“ o AW Ul

Ll f
) - ] A .
ARG

L ]

msp



Massimiliano Berti

Sun-Yung Alice Chang

Michael Christ

Alessio Figalli

Charles Fefferman

Ursula Hamenstaedt

Vaughan Jones

Vadim Kaloshin

Herbert Koch

Izabella Laba

Gilles Lebeau

Richard B. Melrose

Frank Merle

William Minicozzi I

Analysis & PDE
msp.org/apde

EDITORS

EDITOR-IN-CHIEF

Patrick Gérard
patrick.gerard @math.u-psud.fr
Université Paris Sud XI
Orsay, France

BOARD OF EDITORS

Scuola Intern. Sup. di Studi Avanzati, Italy
berti @sissa.it

Princeton University, USA

chang @math.princeton.edu

University of California, Berkeley, USA
mchrist@math.berkeley.edu

ETH Zurich, Switzerland
alessio.figalli@math.ethz.ch

Princeton University, USA
cf@math.princeton.edu

Universitidt Bonn, Germany
ursula@math.uni-bonn.de

U.C. Berkeley & Vanderbilt University
vaughan.f.jones @vanderbilt.edu
University of Maryland, USA
vadim.kaloshin @ gmail.com

Universitit Bonn, Germany
koch@math.uni-bonn.de

University of British Columbia, Canada
ilaba@math.ubc.ca

Université de Nice Sophia Antipolis, France
lebeau @unice.fr

Massachussets Inst. of Tech., USA
rbm@math.mit.edu

Université de Cergy-Pontoise, France
Frank Merle @u-cergy.fr

Johns Hopkins University, USA
minicozz@math.jhu.edu

Clément Mouhot

Werner Miiller

Gilles Pisier

Tristan Riviere

Igor Rodnianski

Sylvia Serfaty

Yum-Tong Siu

Terence Tao

Michael E. Taylor

Gunther Uhlmann

Andris Vasy

Dan Virgil Voiculescu

Steven Zelditch

Maciej Zworski

Cambridge University, UK
c.mouhot@dpmms.cam.ac.uk
Universitdt Bonn, Germany

mueller @math.uni-bonn.de

Texas A&M University, and Paris 6
pisier@math.tamu.edu

ETH, Switzerland

riviere @math.ethz.ch

Princeton University, USA

irod @math.princeton.edu

New York University, USA

serfaty @cims.nyu.edu

Harvard University, USA
siu@math.harvard.edu

University of California, Los Angeles, USA
tao@math.ucla.edu

Univ. of North Carolina, Chapel Hill, USA
met@math.unc.edu

University of Washington, USA
gunther @math.washington.edu
Stanford University, USA

andras @math.stanford.edu

University of California, Berkeley, USA
dvv@math.berkeley.edu

Northwestern University, USA
zelditch@math.northwestern.edu
University of California, Berkeley, USA
zworski @math.berkeley.edu

PRODUCTION
production @msp.org

Silvio Levy, Scientific Editor

See inside back cover or msp.org/apde for submission instructions.

The subscription price for 2018 is US $275/year for the electronic version, and $480/year (4-$55, if shipping outside the US) for print and
electronic. Subscriptions, requests for back issues from the last three years and changes of subscriber address should be sent to MSP.

Analysis & PDE (ISSN 1948-206X electronic, 2157-5045 printed) at Mathematical Sciences Publishers, 798 Evans Hall #3840, c/o Uni-
versity of California, Berkeley, CA 94720-3840, is published continuously online. Periodical rate postage paid at Berkeley, CA 94704, and
additional mailing offices.

APDE peer review and production are managed by EditFlow® from MSP.

PUBLISHED BY
:l mathematical sciences publishers
nonprofit scientific publishing
http://msp.org/
© 2018 Mathematical Sciences Publishers


http://msp.org/apde
mailto:patrick.gerard@math.u-psud.fr
mailto:berti@sissa.it
mailto:chang@math.princeton.edu
mailto:mchrist@math.berkeley.edu
mailto:alessio.figalli@math.ethz.ch
mailto:cf@math.princeton.edu
mailto:ursula@math.uni-bonn.de
mailto:vaughan.f.jones@vanderbilt.edu
mailto:vadim.kaloshin@gmail.com
mailto:koch@math.uni-bonn.de
mailto:ilaba@math.ubc.ca
mailto:lebeau@unice.fr
mailto:rbm@math.mit.edu
mailto:Frank.Merle@u-cergy.fr
mailto:minicozz@math.jhu.edu
mailto:c.mouhot@dpmms.cam.ac.uk
mailto:mueller@math.uni-bonn.de
mailto:pisier@math.tamu.edu
mailto:riviere@math.ethz.ch
mailto:irod@math.princeton.edu
mailto:serfaty@cims.nyu.edu
mailto:siu@math.harvard.edu
mailto:tao@math.ucla.edu
mailto:met@math.unc.edu
mailto:gunther@math.washington.edu
mailto:andras@math.stanford.edu
mailto:dvv@math.berkeley.edu
mailto:zelditch@math.northwestern.edu
mailto:zworski@math.berkeley.edu
mailto:production@msp.org
http://msp.org/apde
http://msp.org/
http://msp.org/

ANALYSIS AND PDE
Vol. 11, No. 6, 2018

dx.doi.org/10.2140/apde.2018.11.1343

PROPAGATION OF CHAOS, WASSERSTEIN GRADIENT FLOWS
AND TORIC KAHLER-EINSTEIN METRICS

ROBERT J. BERMAN AND MAGNUS ONNHEIM

Motivated by a probabilistic approach to Kédhler—Einstein metrics we consider a general nonequilibrium
statistical mechanics model in Euclidean space consisting of the stochastic gradient flow of a given
(possibly singular) quasiconvex N-particle interaction energy. We show that a deterministic “macroscopic”
evolution equation emerges in the large N-limit of many particles. This is a strengthening of previous
results which required a uniform two-sided bound on the Hessian of the interaction energy. The proof
uses the theory of weak gradient flows on the Wasserstein space. Applied to the setting of permanental
point processes at “negative temperature”, the corresponding limiting evolution equation yields a drift-
diffusion equation, coupled to the Monge—Ampere operator, whose static solutions correspond to toric
Kihler—Einstein metrics. This drift-diffusion equation is the gradient flow on the Wasserstein space of
probability measures of the K-energy functional in Kdhler geometry and it can be seen as a fully nonlinear
version of various extensively studied dissipative evolution equations and conservation laws, including
the Keller—Segel equation and Burger’s equation. In a companion paper, applications to singular pair
interactions in one dimension are given.
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1. Introduction

The present work is motivated by the probabilistic approach to the construction of canonical metrics, or
more precisely Kdhler—Einstein metrics, on complex algebraic varieties introduced in [Berman 2013a;
2017], formulated in terms of certain S-deformations of determinantal (fermionic) point processes. The
approach in those papers uses ideas from equilibrium statistical mechanics (Boltzmann—Gibbs measures)
and the main challenge concerns the existence problem for K#hler—Einstein metrics on a complex
manifold X with positive Ricci curvature, which is closely related to the seminal Yau—Tian—Donaldson
conjecture in complex geometry. In this paper, which is one in a series, we will be concerned with a

MSC2010: 00AO05.
Keywords: statistical mechanics, Kidhler—Einstein metrics, propagation of chaos, Langvin equation.
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dynamic version of the probabilistic approach in [Berman 2013a; 2017]. In other words, we are in the
realm of nonequilibrium statistical mechanics, where the relaxation to equilibrium is studied. As the
general complex geometric setting appears to be extremely challenging, due to the severe singularities
and nonlinearity of the corresponding interaction energies, we will here focus on the real analog of the
complex setting introduced in [Berman 2013b], taking place in R” and which corresponds to the case when
X is a toric complex algebraic variety. As explained in that paper in this real setting the determinantal
(fermionic) processes are replaced by permanental (bosonic) processes and convexity plays the role of
positive Ricci curvature/plurisubharmonicity (see Section 5C for some geometric background).

Our main result (Theorem 1.1) shows that a deterministic evolution equation on the space of all
probability measures on R" emerges from the underlying stochastic dynamics, which as explained below,
can be seen as a new “propagation of chaos” result. The evolution equation in question is a drift-diffusion
equation coupled to the fully nonlinear real Monge—Ampere operator. It turns out that in the case of the
real line (i.e., n = 1) this equation is closely related to various extensively studied evolution equations,
notably the Keller—Segel equation in chemotaxis [Keller and Segel 1970], Burger’s equation [Hopf 1950;
Frisch and Bec 2001] in the theory of nonlinear waves and scalar conservation laws and the deterministic
version of the Kardar—Parisi—Zhang (KPZ) equation describing surface growth [Kardar et al. 1986]. In
the higher-dimensional real case, the equation can be viewed as a dissipative viscous version of the
semigeostrophic equation appearing in dynamic meteorology; see [Loeper 2006; Ambrosio et al. 2014].
Moreover, closely related evolution equations appear in cosmology and in particular in Brenier’s approach
to the Zeldovich model used in the early universe reconstruction problem [Shandarin and Zel’dovich
1989; Frisch et al. 2002; Brenier 2011; 2016].

As we were not able to deduce the type of propagation of chaos result we needed from previous general
results and approaches, the main body of the paper establishes the appropriate propagation of chaos result,
which, to the best of our knowledge, is new and hopefully the result, as well as the method of proof,
is of independent interest. As will be clear below, our approach heavily relies on the theory of weak
gradient flows on the Wasserstein L?-space P,(R") of probability measure on R" developed in the seminal
work of Ambrosio, Gigli and Savaré [Ambrosio et al. 2005], which provides a rigorous framework for
the Otto calculus [2001]. In particular, just as in [Ambrosio et al. 2005], convexity (or more generally
A-convexity) plays a prominent role. Our limiting evolution equation will appear as the gradient flow on
P>(R") of a certain free-energy-type functional F. Interestingly, as observed in [Berman 2013c; Berman
and Berndtsson 2013] the functional F may be identified with Mabuchi’s K-energy functional on the
space of Kihler metrics, which plays a key role in Kédhler geometry. The gradient flows of F* with respect
to other metrics (the Mabuchi—-Donaldson—Semmes metric and Calabi’s gradient metric) are the renowned
Calabi flow and Kihler—Ricci flow respectively [Chen and Zheng 2013]. The regularity and large-time
properties of the evolution equation appearing here will be studied elsewhere [Berman and Lu > 2018;
Berman > 2018].

In the remaining part of the introduction we will state our main results: first a general propagation of
chaos result, assuming a uniform Lipschitz and convexity assumption on the interaction energy, and then
the application to permanental point processes and toric Kidhler—Einstein metrics. In the companion paper
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[Berman and Onnheim 2016] we give a more general formulation of the propagation of chaos result, by
relaxing some of the assumptions (in particular, this yields sharp convergence results for strongly singular
repulsive pair interactions when n = 1).

1A. Propagation of chaos and Wasserstein gradient flows. Consider a system of N identical particles
diffusing on the n-dimensional Euclidean space

X:=R"

and interacting by a symmetric energy function E™)(x1, x5, ..., xy), at a fixed inverse temperature f.
According to nonequilibrium statistical mechanics, the distribution of particles at time ¢ is described by
the following system of stochastic differential equations (SDEs), under suitable regularity assumptions

on EM):

9 2
dx; (1) = —WE(N)()Q, X2, ..., xn)df + \/%dB,- (1), (1-1)

1

where B; denotes N independent Brownian motions on R"; the equation is called the (overdamped)
Langevin equation in the physics literature [Schwabl 2002, Section 8.1.2]. In other words, this is the
1t diffusion on R" describing the (downward) gradient flow of the function E™) on the configuration
space X perturbed by a noise term. A classical problem in mathematical physics going back to Boltzmann
and made precise by Kac [1956] is to show that, in the many-particle limit where N — oo, a deterministic
macroscopic evolution emerges from the stochastic microscopic dynamics described by (1-1). More
precisely, denoting by § the empirical measures

1
Sy = NZ‘SM’ (1-2)

the SDEs (1-1) define a curve §y(¢) of random measures on X. The problem is to show that, if at the
initial time ¢ = 0 the random variables x; are independent with identical distribution ¢, then the empirical
measure éy (f) converges in law to a curve u, of measures on R”,

lim Sy (t) = w (1-3)
N—oo

at any time ¢ > 0. In the terminology of [Kac 1956], see also [Sznitman 1991], this means that propagation
of chaos holds. It should be stressed that the previous statement admits a pure PDE formulation, not involv-
ing any stochastic calculus (see Section 2C) and it is this analytic point of view that we will adopt here.'

Of course, if propagation of chaos is to hold then some consistency assumptions have to be made on
the sequence E™) of energy functions as N tends to infinity. The standard assumption in the literature
ensuring that propagation of chaos does hold is that E™) (xy, x5, ..., xy) can be as written as

EM(x1,x2,...,x5) = NE@y) (1-4)

for a fixed functional E on the space of P(X) of all probability measures on X, where E is assumed to
have appropriate regularity properties (to be detailed below). This is sometimes called a mean field model.

From a differential geometric point of view the SDEs (1-1) correspond, under the transformation p — eE/2)1, 1o the heat
flow on XV of the Witten Laplacian of the “Morse function” E, but we will not elaborate on this point here.
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By the results in [Braun and Hepp 1977; Sznitman 1991; Dawson and Gértner 1987; Mischler et al.
2015], it then follows that the limit u,(= p; dx) with initial data uo(= pg dx) is uniquely determined
and satisfies an explicit nonlinear evolution equation on P (X) of the form

dpy 1

E = EAIOt — V- (o:blp]), (1-5)

where we have identified u(= p dx) with its density p and b[u] is a function on P(X) taking values in
the space of vector fields on X:

blul=—=V(dE\), (1-6)

where the differential dE|,, at u is identified with a function on X, by standard duality (the alternative
suggestive notation b[p] = —V (0 E(p)/dp) is often used in the literature). In the kinetic theory literature
drift-diffusion equations of the form (1-6) are usually called McKean—Viasov equations [McKean 1966;
1967]. More generally, the results referred to above hold in the more general setting where the gradient vec-
tor field —(8/8x,-)E(N)(x1, X2, ...,xy) on X appearing in (1-1) is replaced by b[§y] for a given function
b[u] on P(X), taking values in the space of vector fields and satisfying appropriate continuity properties.

One of the main aims of the present work is to introduce a new approach to the propagation of chaos
result (1-3) for the stochastic dynamics (1-1) which exploits the gradient structure of the equations in
question and which applies under weaker assumptions than the previous results, referred to above. As
indicated above, our main motivation for weakening the assumptions comes from the applications to toric
Kihler—FEinstein metrics described below. In that case EV) satisfies the following assumptions, which
will be referred to as the main assumptions: E™) is uniformly Lipschitz continuous in each variable
separately, i.e., there is a constant C such that

(MAL) v, EM<C, (1-7)

and there exists a (finite) functional E (i) on the Wasserstein space P(R") such that

(MA2) %E(N)(xl,xz, L xn) = EGy) +o(D), (1-8)

where o(1) denotes a sequence of functionals on P(R") converging pointwise to zero on P(R") as N — 0.
Moreover, E™) is A-convex on XV for some real number A, which means that the (distributional) Hessians
are uniformly bounded from below on R"V,

(MA3) (VZEM)Y > a1, (1-9)

where I denotes the identity matrix on R"Y. This implies, in particular, that there exists a unique solution
to the evolution equation (1-5) in the sense of weak gradient flows on the space P> (R") of all probability
measures with finite second moments equipped with the Wasserstein L2-metric [Ambrosio et al. 2005]:

i

=—-VF, ,
dr ﬂ(Mt)
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where Fjg is the free-energy-type functional corresponding to the macroscopic energy E () at inverse

temperature g,
1
B

and where H (u) is the Boltzmann entropy of u (see Section 2A for notation).

Fg(u) = E(u) + Z H(w),

Theorem 1.1. Let EYY) be a sequence of symmetric functions on (R satisfying the main assumptions
(1-8), (1-7) and (1-9) and consider the corresponding system of SDEs (1-1). If the initial data x;(0)
consists of independent and identically distributed random vectors with law g € P(R"), then, at any
fixed positive time t, the corresponding empirical measures converge in law, as N — 00, to the measure
ws € P2(R™), where the curve t — ; is the gradient flow on the Wasserstein space P(R") of the free

energy functional Fg, emanating from jio.

In fact, the convergence of the laws will be shown to hold in the L2-Wasserstein topology. This leads
to a strong form of propagation of chaos in the present setting (implying that the correlations between the
random vectors x; (#) and x;(¢) tend to zero as N — oo, if i # j; see Section 3B).

It should be stressed that the key point of our approach is that we do not need to assume that the
drift b[4](x) defined by (1-6) has any continuity properties with respect to x or x, in contrast to previous
work [Braun and Hepp 1977; Sznitman 1991; Dawson and Gértner 1987; Mischler et al. 2015]. This will
be crucial in the applications to toric Kihler—Einstein metrics, where the interaction energies EV) are
smooth and convex, but the norms of corresponding Hessians are not uniformly bounded in N (which is
reflected in the fact that the corresponding function x — b(u)(x) is not continuous for a general ).

We recall that if the drift is assumed to have suitable continuity properties, then the existence of a
solution to the drift-diffusion equation (1-5) can be established using fixed-point-type arguments [Sznitman
1991]. However, in our case we have, in general, to resort to the weak gradient flow solutions provided
by the general theory in [Ambrosio et al. 2005], where the solution p, can be characterized uniquely by a
differential inequality called the evolutionary variational inequality (EVI). As shown in that work, the
corresponding solution p; satisfies the drift-diffusion equation (1-5) in a suitable weak sense, as follows
formally from the Otto calculus [Otto 2001].

1A1. Idea of the proof of Theorem 1.1 and comparison with previous results. The starting point of the
proof is the basic fact that the SDEs (1-1) on X" admit a PDE formulation. Indeed, as recalled in
Section 2C, they correspond to a linear evolution y (¢) of probability measures (or densities) on X ¥,
given by the corresponding forward Kolmogorov equation (also called the Fokker—Planck equation).
Given this fact, our proof of Theorem 1.1 proceeds in a variational manner, building on [Jordan et al.
1998; Ambrosio et al. 2005] (and inspired by the approach introduced in [Messer and Spohn 1982] in the
static setting of Gibbs measure): the rough idea is to show that any weak limit curve I'(¢) of the laws

In@) == On)sun @) € P2(Y), Y =Pr([RY),

is of the form I' () :=§,,,, where the curve i, in P> (R") is uniquely determined by a “dynamic minimizing
property”. To this end we first discretize time, by fixing a small time mesh 7 :=1#; | —1;, and replace, for
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any fixed N, the curve I'y (#) with its discretized version '} (#;), defined by a variational Euler scheme (a
“minimizing movement” in De Giorgi’s terminology) as in [Jordan et al. 1998; Ambrosio et al. 2005].
We then establish a discretized version of Theorem 1.1 saying that if, at a given discrete time #;, the
convergence

lim TN =4
N—oco

I

holds in the L?-Wasserstein metric then the convergence also holds at the next time step tj+1 (using a
variational argument). In particular, since, by assumption, the convergence above holds at the initial
time 0 it “propagates” by induction to hold at any later discrete time. Finally, we prove Theorem 1.1 by
letting the mesh t tend to zero. This last step uses that the error estimates established in [Ambrosio et al.
2005], for discretization schemes as above, only depend on a uniform lower bound A on the convexity of
the interaction energies.

Our proof appears to be rather different from the probabilistic approaches in [Sznitman 1991; Dawson
and Girtner 1987], which are based on a study of nonlinear martingales, and the recent PDE approach in
[Mischler et al. 2015]. The latter approaches require a two-sided uniform bound on the Hessian of the
interaction energy EV), while we only require a uniform lower bound.

It may also be illuminating to think about the convergence of 'y (#) towards I"(¢) as a kind of stability
result for the sequence of weak gradient flows on P,(Y), associated to the corresponding mean free
energies, viewed as functionals on P,(Y). This situation is somewhat similar to the stability result for
gradient flows on P,(H) in [Ambrosio et al. 2005; 2009], where H is a Hilbert space, but the main
difference here is that the underlying space Y is not a Hilbert space, as opposed to the setting in those
works, which prevents one from directly applying the error estimates in [Ambrosio et al. 2005] on the
space P>(Y) itself; this analog is expanded on in the companion paper [Berman and Onnheim 2016].

1B. Applications to permanental point processes at negative temperature and toric Kihler—Einstein
metrics. Let P be a convex body in R" containing zero in its interior and denote by Pz the lattice points
in P, i.e., the intersection of the convex body P with the integer lattice Z". We fix an auxiliary ordering

P1,--., pn of the N elements of Pz. Given a configuration (xi, ..., xy) of N points on X, we denote
by Per(xy, ..., xy) the number defined as the permanent of the rank-N matrix with entries A;; :=e*'/i:
Per(xy, ..., xy) = Per(e"P) = Y grPrttwrow, (1-10)

oeSy

where Sy denotes the symmetric group on N letters. This defines a symmetric function on R"Y which is
canonically attached to P (i.e., it is independent of the choice of ordering of P7).”> We will consider the
large-N limit which appears when P is replaced by the sequence kP of scaled convex bodies for any
positive integer k. In particular, N depends on k as

K"V (P)
Ny = ———— +o(k"),
n!
2In many body quantum mechanics Per(xq, ..., xp) appears as the N-particle wave function for a bosonic system of N

particles represented by the N wave functions ¢/, i.e., N planar waves with imaginary momenta proportional to pj-
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where V (P) denotes the Euclidean volume of P. In this setting the interaction energy is defined by

1
k

To simplify the notation we will often drop the explicit dependence of N on k.

EMNO(xy, ..., xy,) =+ logPer(xi, ..., xp,). (1-11)

By the results in [Berman 2013b], the assumptions in Theorem 1.1 hold with

E(u) :=—-C(n),
where C(u) is the Monge—Kantorovich optimal cost for transporting p to the uniform probability
measure vp on the convex body P, with respect to the standard symmetric quadratic cost function c(x, p) =
—x - p. Hence, the corresponding free-energy functional may be written as

Fg(u) = =C(u) + %H(M)- (1-12)

Theorem 1.2. Assume that 8 > 0 and consider the system of SDEs (1-1), defined by the interaction energy
(1-11). If the initial data x;(0) consists of independent and identically distributed random vectors with
law o € Pr(R™), then at any fixed positive time t, the corresponding empirical measures converge in law,
as N — 00, to the measure |u; € Po(R"), where the curve t — i, is the gradient flow on the Wasserstein
space P>(R") of the free energy functional Fg (1-12) emanating from o. The corresponding densities p;
on R" satisfy the following evolution PDE in the distributional sense:

00 1
—— =—A V- (o;Vo,), 1-13
ot B pr + V- (0: V) ( )
where ¢;(x) is the “convex potential” of p;, i.e., the convex function on R" solving the Monge—Ampére
equation
1 20
V) det(3°¢;) = pr (1-14)
(in the weak sense of Alexandrov) normalized so that ¢ (0) = 0 and satisfying the growth condition
¢(x) <supp-x (1-15)
peP

(equivalently, the closure of the gradient image of ¢ is equal to P).

Let us briefly explain how Theorem 1.2 provides a stochastic dynamic approach for constructing
Kihler—Einstein metrics on toric varieties; details will appear in a separate publication [Berman > 2018].
We first recall that the Kéhler potential of such a metric can be identified with a convex function ¢
satisfying the Monge—Ampere equation on R”

det(d%¢) = e, (1-16)

subject to the growth condition (1-15), with P being the moment polytope of the toric variety; see [Wang
and Zhu 2004; Berman and Berndtsson 2013]. Now, a direct computation reveals that the corresponding
density p := det(8%¢) (which may be identified with the volume form of the Kihler—FEinstein metric) is
a stationary solution of the evolution equation appearing in Theorem 1.2. This is consistent, as it must
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be, with the fact that the free-energy functional Fg (1-12) may be identified with Mabuchi’s K-energy
functional on the space of Kihler metrics (when 8 = 1), whose minimizers are precisely the Kahler—
Einstein metrics [Berman 2013c; Berman and Berndtsson 2013]. As shown in [Berman > 2018], this fact
can be used to show that the solution p; of the evolution equation appearing in Theorem 1.2 converges,
when t — 00, to the volume form of a Kidhler—Einstein metric on X p, if such a metric exists, which, in
turn, is equivalent to the vanishing of the barycenter of the polytope P [Wang and Zhu 2004; Berman
and Berndtsson 2013]. As discussed in Section 5A this can be viewed as a generalization of well-known
stability properties for scalar conservation laws. The upshot of all this is that letting first N and then
t tend to infinity in the SDEs (1-1), corresponding to the interaction energy (1-11), produces a toric
Kéihler-Einstein metric, when such a metric exists.

As we point out in Sections 4D, 5C1 our results also apply to the tropical analog of the permanental
setting above, which can be viewed as the tropicalization of the complex geometric setting on the
corresponding toric variety. In the corresponding deterministic setting (i.e., By = 00) the particles then
perform zigzag paths in R” generalizing the extensively studied sticky particle system on R [Weinan et al.
1996; Brenier and Grenier 1998; Natile and Savaré 2009]. This is closely related to the Zeldovich model
for the formation of large-scale structures in cosmology; see [Frisch et al. 2002; Brenier 2011; 2016]
(compare to the discussion in Section 5B).

There is also a static analog of Theorem 1.2 (formulated in terms of Gibbs measures), which yields a
probabilistic tropical analog of the Yau—Tian—Donaldson conjecture on toric Fano varieties linking the
existence problem for toric Kdhler—Einstein metrics to a notion of stability. This result first appeared
in a previous preprint version of the present paper on the arXiv, but it has been deferred to a separate
publication to shorten the present paper.

1C. Generalizations of Theorem 1.1. Let us conclude this introduction by pointing out that Theorem 1.1
admits various generalizations, obtained by weakening the assumptions, which are developed in the
companion paper [Berman and Onnheim 2016]:

« By rescaling E®N) we may as well allow the “inverse temperature” 8 appearing in the SDEs (1-1) to
depend on N as long as
By — B €10, oa],

as N — oo. In particular, Theorem 1.1 also applies to 8 = oo where the evolution equation (1-5) becomes
a pure transport equation (i.e., with no diffusion). However, the precise relation to weak solutions becomes
much more subtle and is closely related to the notions of entropy solutions and viscosity solutions studied
in the PDE literature [Lax 1973], as detailed in [Berman and Onnheim 2016]. In fact, one may even allow
that By = oo, where the corresponding convergence results yields a deterministic mean field particle
approximation.

e The assumptions (MA1) and (MA2), formulas (1-7), (1-8), may be replaced by a uniform coercivity
assumption on E™ together with the assumption that the mean energies corresponding to E®) converge
as functionals on P> (P>(R)), in a suitable sense (which is closely related to the notion of I"-convergence).
This ensures that a weaker form of Proposition 3.6 holds.
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« The convexity assumption (MA3) on E®) may be replaced by a generalized convexity property of the
corresponding mean energy functional on P, (R"V)5¥,

1D. Organization. In Section 2 we start by recalling the general setup that we will need from probability,
the theory of Wasserstein spaces and weak gradient flows and then turn to the proof of Theorem 1.1 in
Section 3B (starting with the discretized situation). In Section 4 we go on to apply the previous general
results to the permanental setting and its tropical analog. In the final section we provide on outlook on
some relations to conservation laws, sticky-particle-type systems and complex geometry. The Appendix
recalls the basics of the formal Otto calculus and is included to serve as a motivation for the material on
Wasserstein gradient flows. The rather lengthy setup and preparatory material in Section 2 are due to our
effort to make the paper readable to a rather general audience.

2. General setup and preliminaries

2A. Notation. Given a topological (Polish) space Y we will denote the integration pairing between
measures i on Y (always assumed to be Borel measures) and bounded continuous functions f by

(f. 1) :=/fu

(we will avoid the use of the symbol du since d will usually refer to a distance function on Y). In the
case Y = RP we will say that a measure . has a density, denoted by p, if 1 is absolutely continuous with
respect to Lebesgue measure dx and p = p dx. We will denote by P(RP) the space of all probability
measures and by P,.(RP) the subspace containing those with a density. The Boltzmann entropy H(p)
and Fisher information I (p) (taking values in ]—o00, 0o]) are defined by

IVpl?

H(p) := /Rn(logp),odx, I(p)=fRD dx (2-1)

(assuming that Vp € L'(dx) and p~'Vp € L?*(pdx)). More generally, given a reference measure (g
on Y the entropy of a measure p relative to pg is defined by

Hoo (1) = / (log i)u (22)
XN Mo

if the probability measure p on X is absolutely continuous with respect to g and otherwise H () := oco.
The relative Fisher information is defined similarly, by replacing p with the density /o in formula (2-1).

Given a lower semicontinuous (/sc, for short) function V on Y and g € ]0, oo] (the “inverse temperature”)
we will denote by F };/ the corresponding (Gibbs) free-energy functional with potential V :

F (n) = / Vit %Huo(u), (2-3)
X

which coincides with 1/8 times the entropy of u relative to e~ uy.
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2B. Wasserstein spaces and metrics. We start with the following very general setup. Let (X, d) be a
given metric space, which is Polish, i.e., separable and complete, and denote by P(X) the space of all
probability measures on X endowed with the weak topology, i.e., u;j — p weakly in P(X) if and only if
f i f— f x mf for any bounded continuous function f on X (this is also called the narrow topology in
the probability literature). The metric d on X induces [”-type metrics on the N-fold product X¥ for any
given p € [1, ool:

N 1/p
dp(X1, ..o s XNS Y1s e o s YN) = <Zd(xi,yz')p) .
i=1

The permutation group Sy on N letters has a standard action on X%, defined by (o, (x1, ..., xn)) —
(Xo(1)s - - - » Xo(vy) and we will denote by X and 7 the corresponding quotient and quotient projection,
respectively:

XM= xN/gN o g xN 5 xWNV), (2-4)

The quotient X™ may be naturally identified with the space of all configurations of N points on X. We
will denote by d(,) the induced distance function on XV, suitably normalized:

N 1/p
. e 3 1 2 . P
d(p)(xl,...,xN,yl,...,yN) ._nlél;N(N : ld(x,,yg(,)) ) .
1=

The normalization factor 1/N'/P ensures that the standard embedding of X into the space P(X) of all
probability measures on X,

(V) =L ]
XM s P(X), (xl,...,xN)HSN.—NZSXi (2-5)

(where we will call §y the empirical measure), is an isometry when P(X) is equipped with the
L?-Wasserstein metric dyr induced by d (for simplicity we will also write dw, =dp),

dy, (u,v) = inf/ d(x, y)'y, (2-6)
p 14

XxX
where y ranges over all couplings between w and v; i.e., y is a probability measure on X x X whose
first and second marginals are equal to u and v respectively (see Lemma 2.3 below). We will denote by
WP (X, d) the corresponding L?-Wasserstein space, i.e., the subspace of P(X) consisting of all u with
finite p-th moments: for some (and hence any) xg € X

/ d(x, x0)? u < oo.
X

We will also write WP (X, d) = P,(X) when it is clear from the context which distance d on X is used.

Remark 2.1. In the terms of the Monge—Kantorovich theory of optimal transport [ Villani 2003], dé’vp (n,v)
is the optimal cost for transporting @ to v with respect to the cost functional c(x, p) := d(x, y)’.
Accordingly a coupling y as above is often called a transport plan between p and v and it is said to be
atransport map T if y = (I x T).u, where T, = v. In particular, if X =R", p =2 and u and v are
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absolutely continuous with respect to Lebesgue measure, then, by Brenier’s theorem [1991], the optimal
transport plan y is always defined by a transport map 7'(:= T})) of the form 7] = V¢, where ¢ is a
convex function on R" (optimizing the dual Kantorovich functional).

We recall the following standard proposition:

Proposition 2.2. A sequence ; converges to i in the distance topology in WP (X, d) if and only if ;
converges to |1 weakly in P(X) and the p-th moments converge. As a consequence, if [1; converges to
u weakly in ‘P(X) and the p-th moments are uniformly bounded, i.e., for some xo € X there exists a
constant Cqy such that

/ d(x, x0)" 1 < Co,
X

then i converges to i in the distance topology in WP (X, d) forany p' < p.

Proof. For the first statement see for example [Villani 2003, Theorem 7.12]. The second statement is
certainly also well known, but for completeness we include a simple proof. Fix xg € X and take the
decomposition

/d(xsxO)pszf d(x, xo)" Mj-i-/ d(x, x0)" ;.
X {d(x,x0)<R} {d(x,x0)>R}

Since d(x, xo)p/ <d(x,x0)?/ RP=P) when d (x, x0) > R, the second integral above is bounded from
above by Co/R(P~P"). Moreover, by the assumption of weak convergence, the first term above converges
to f{ d(x.x0)<R) d(x, x0)” , as j — oo. Finally, letting R tend to infinity concludes the proof. O

Since ¥, := (W), (X), dw,) (:= P,(X)) is also a Polish space we can iterate the previous construction
and consider the Wasserstein space W, (Y) C P(P(X)) that we will write as W, (P, (X)), which is thus
the space of all probability measures I' on P(X) such that, for some o € W, (X),

/ dp(p, o) I' < o0.
P(X)

Lemma 2.3 (three isometries).

o The empirical measure 8y defines an isometric embedding (X, dipy) = Pp(X).

o The corresponding push-forward map (8x)+ from P(XMN)) to P(P(X)) induces an isometric embed-
ding between the corresponding Wasserstein spaces W (X ), d(p)) and W, (P,(X)).

o The push-forward 1, of the quotient projection w : XY — XN induces an isometry between the

subspace of symmetric measures in W, (xV, (l/Nl/”)dp) and the space W, (XM, dpy)-

Proof. The first statement is a well-known consequence of the Birkhoff—Von Neumann theorem which
gives that for any symmetric function c(x, y) on X x X we have that if u = % Z,N: 10y, and v = % ZIN: 18y,
for given (x1,...,xy), (1»..., yn) € XV, then

inf c(x,y)dl'= inf c(x, y)dr,
F(uw)/( ») FN(M,v)/( »)



1354 ROBERT J. BERMAN AND MAGNUS ONNHEIM

where 'y (u, v) C I'(u, v) consists of couplings of the form ', := % D8 ® 8y, for o € Sy, where
Sy is the symmetric group on N letters. The second statement then follows from the following general
fact: if f: (Y1,d1) — (Y2, d») is an isometry between two metric spaces, then f, gives an isometry
between W, (Y1, dy) and W, (Y2, d3). This follows immediately from the definitions once one observes
that one may assume that the coupling y, between f,u and f,v is of the form f,y; for some coupling y,
between p and v. The point is that y can be taken to be concentrated on f(Y;) x f(Y3) (since this set
contains the product of the supports of ;& and v) and hence one can take y; := (f 1® f _1)*)/2, where
(F'® F YU, FO)) := (v, y') is well-defined, since f induces a bijection between Y| and f(Y}).
Finally, the last statement follows immediately from the following general claim applied to ¥ = XV with
d=(1/N'P)dxn;, and G = Sy. Let G be a compact group acting by isometries on a metric space (Y, d)
and consider the natural projection 7 : ¥ — Y /G. We denote by d¢ the induced quotient metric on Y/ G.
The push-forward 7, gives a bijection between the space P(X)¢ or all G-invariant probability measures
on X and P(X/G). The claim is that 7, induces an isometry between the corresponding Wasserstein
spaces Py (X)S and P,(X/G);ie., dwq (i, v) =dw, (T t, TV) if i and v are G-invariant; see [Lott and
Villani 2009, Lemma 5.36]. O

Let us also recall the following classical result

Lemma 2.4. Let wy be a probability measure on X. Then (SN)*M?N — 8y, in P(P(X)) weakly as
N — oo.

In fact, according to Sanov’s classical theorem the previous convergence result even holds in the
sense of large deviations at speed N with rate functional given by the relative entropy functional H,(-)
[Dembo and Zeitouni 1993, Theorem 6.2.10].

2B1. The present setting. We will apply the previous setup to X = R” endowed with the Euclidean
metric d. Moreover, we will mainly use the case p = 2. Then the corresponding metric d» on XV is
the Euclidean metric on X" = RV, Identifying a symmetric (i.e., Sy-invariant) probability measure iy
on XV with a probability measures on the quotient XV (as in Lemma 2.3) the second and third points
in Lemma 2.3 may (with ¢ = 2) be summarized by the following chain of equalities that will be used
repeatedly below:

1
2w 1y)? =dey ey wy)? = diwypaeny Dy T, @7

where I'y and I')y, denote the push-forwards under § of 1x and 'y respectively. To simplify the notation
we will often simply write

d := dw,p,Rm))

for the metric on W5 (P> (R")) (or sometimes d = d5).

2C. The forward Kolmogorov equation for the SDEs and the mean free energy Fy g. Fix a positive
integer N and 8 > 0 (which may depend on N when we will later on let N — o0). Let (X, g) be a
Riemannian manifold and denote by dV the volume form defined by g. In our case (X, g) will be the
Euclidean space R™
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Consider the SDEs (1-1) on XV with the initial condition that x; (0) are independent random variables
with identical distribution 1o € P(RP). As is well known, under suitable regularity assumptions, this
defines, for any fixed T, a probability measure n7 on the space of all continuous curves (‘“sample paths”)
in XV, i.e., the space of continuous maps [0, 7] — X N [Stroock and Varadhan 1997, Chapter 5]. For ¢
fixed we can thus view x™(¢) as an X" -valued random variable on the latter probability space. Then its
law

N
w™M = M)y,

gives a curve of probability measures on XV) of the form M(N) (N)dV®N where the density p(N)
satisfies the corresponding forward Kolmogorov equation

™ _1

ot B

which thus coincides with the linear Fokker-Planck equation (A-6) on XV with potential V := E), In
this formula the initial conditions for the SDEs translates to

Ao+ - (o VE™), (2-8)

lfv\(,N)() = M() . (2-9)

In particular, the law of the empirical measures §y (¢) for the SDEs (1-1) can be written as the following
probability measure on P(X):

Ty (1) == Sn)al”,

where §y is the empirical measure defined by (2-5).

Anyway, for our purposes we may as well forget about the SDEs (1-1) and take the forward Kolmogorov
equation (2-8) on X" as our the starting point, together with the initial condition (2-9). We will exploit
the well-known fact, going back to [Jordan et al. 1998] (see Theorem 2.14 below) that the latter evolution
equation can be interpreted as the gradient flow on the Wasserstein space P>(X") of the functional

1
Fg’“(w) =/ ENpun+—H(uy),
XN B

where H (- ) is the entropy relative to pg:=d VON formula (2-2); occasionally we will omit the subscript 8
in the notation F éN).

Following standard terminology in statistical mechanics we will call the scaled functional Fy g :=
F éN) /N the mean free energy, which is thus a sum of the mean energy En(:= Fn ) and the mean
entropy Hy (i ):

lHN;

Fnpg=EnN+ B

1.€.,

1
Fypun) = 5 B ) = f EMuy + —H(uN) (2-10)

N

Note that it follows immediately from the definition that the mean entropy is additive: for any u € P(X)

Hy(u®V)y = H(w).
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In the case dV is a probability measure, it follows immediately from Jensen’s inequality that H () > 0.
In our Euclidean setting this is not the case but using that [ e~ dx < oo for any given € > 0 one then
gets

Hw = ¢ [ 1iPu-c.. @-11)
As a consequence we have the following:

Lemma 2.5. If the mean energy satisfies the uniform coercivity property

1 (N) 1 2
- E > —=—d )™ — 2-12
N fX JEM ) 2 =5 (. TP = € (2-12)

for some fixed T, > 0 and T'y, € W5 (P (X)) and positive constant C, then so does F'N)/N.

Remark 2.6. The linear forward Kolmogorov equation (2-8) can also be viewed as the gradient flow of
the mean free energy + F™) if one instead uses the scaled metric gy := +.¢®" on X". Moreover, in our
case, E™) will be symmetric, i.e., Sy-invariant, and hence the flow defined with respect to (X N gN)
descends to the flow defined with respect to XV := XV /Sy equipped with the distance function dyw)
defined in Section 2B. Using the isometric embedding defined by the empirical measure (Lemma 2.3) we
can thus view the sequence of flows on the sequence of spaces P(X") as a sequence of flows on the same
(infinite-dimensional) space W, (P (X)) and this is the geometric motivation for the proof of Theorem 1.1.

2D. Propagation of chaos and the L*-Wasserstein topology. First recall [Sznitman 1991] that a se-
quence ™) of symmetric probability measures on X” is said to be chaotic if there exists a probability

measure p on X such that, for any given finite number of functions fi, ..., fx in Cp(X),
tim [ i fieon® = [ e [ @-13)
N=o0 Jxn X X

(more precisely, then u™) is called p-chaotic).

Equivalently [Sznitman 1991, Proposition 2.2], this means that the empirical measure §y on the
probability space (XV, u™) converges in law towards u, i.e., the following convergence holds with
respect to the weak topology in P(P(X)):

lim (8x)pu'™ =3,,.
N—o0

Now consider the system of SDEs (1-1) and assume that the initial random variables x(0), ..., xx(0)
are independent with identical law . This means that the corresponding curve of probability measures
u™(t) on XV (evolving by the forward Kolmogorov equation corresponding to the SDEs) is given by
n&N when t = 0 (i.e., the initial condition (2-9) holds). In particular, 1« (¢) is 11o-chaotic when ¢ =0 (by
Lemma 2.4). In the terminology introduced by Kac, propagation of chaos is said to hold if the sequence
w™N)(¢) remains chaotic for any positive time ¢, i.e., if there exists a curve j(¢) in P(X) emanating from
o such that the sequence w™ (1) is w(t)-chaotic for any t > 0.

In the present setting of Theorem 1.1 we will establish propagation of chaos in a stronger sense.
Namely, we will show that if 119 € P2(R"), then (85).u™)(¢) converges to 8, in P2(P2(R")), with
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respect to the topology defined by the Wasserstein L?-metric. This is stronger than propagation of chaos
YN, ) tend to
zero as N — oo (by symmetry this equivalently means that the correlations between x; and x; tend to

since it also implies that the correlations between the random variables x; and x, on ((R”

zero, if i # j). This is made precise by the following lemma, where (x), denotes the «-th component of
a vector x € R":

Lemma 2.7. Let u™) be a sequence of symmetric probability measures on (RN such that ()™ (1)
converges to 8, in Pr(P>(R")), with respect to the topology defined by the Wasserstein L?-metric. Then
u™N) is u-chaotic and moreover, for any given (a1, o) € {1, ..., n}>

(En (D) ey (¥2)ay) = En ((¥1)a) En (¥2)a)) = 0,

lim
N—o00
where Ey denotes the expectation with respect to ™.

Proof. This follows readily from the definitions, but for completeness we provide a proof. By assumption
the probability measures I'y := (8x)u™) converge to 8, in Pr(P>(R™)) in the Wasserstein L?-metric.
Using Proposition 2.2 this convergence is equivalent to having

lim [ Ty® = ®(w) (2-14)

N—o00

for any continuous function ® on P,(R") of subquadratic growth, i.e., ®(v) < Cod%‘,z(v, Vo) + Cy for a
fixed element vy € P>(R"). Taking vo = §p, the latter growth condition means that

d(v) sc/ Pyt C (2-15)

for some constant C. In particular, setting ®(v) := [ fiv--- [ fxv for given bounded continuous functions
f1. ..., fr and expanding reveals that (2-13) holds, showing that propagation of chaos holds. At this
point we have only used the convergence of I'y towards §,, in the weak topology, just as in the proof of
one direction of [Sznitman 1991, Proposition 2.2]. But taking ®(v) = [(x)q, v [ (x)a,v (Which satisfies
(2-15), using Holder’s inequality) gives

f Iyd=N7Y" f (X1 )ary (X7 )y 1t
i,j<N

=N"(N*—N) / Doy (2)eu ™ + N7 f N7 @ () ™.

i<N

Hence, letting N — oo and using the convergence in (2-14) gives

Jim f (e (42)ert ™ +0 = f (o 4 / (Va1

Finally, applying the convergence in (2-14) to ®(v) = [(x)qv and using symmetry reveals that the
right-hand side above is equal to the limit of Ey ((x1)e,) times Ey((x2)4,) as N — o0. O
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2E. Gradient flows on the L*-Wasserstein space and variational discretizations. In this section we
will recall the fundamental results from [Ambrosio et al. 2005] that we will rely on. Let G be a lower
semicontinuous function on a complete metric space (M, d). In this generality there are, as explained in
that work, various notions of weak gradient flows u, for G (or “steepest descents”) emanating from an
initial point ug in M, symbolically written as

dl/l[
dt

The strongest forms of weak gradient flows on metric spaces discussed in [Ambrosio et al. 2005]

=—VGu). limu() = uo. (2-16)

concern A-convex functionals G and are defined by the property that u, satisfies the evolution variational
inequalities (EVI)
14 2o, v+ Gu)) + 2d2(u, v)? < G)  ae.t >0,
2 dt 2 - 2-17)
forallve M, G(v) < oo,
together with the initial condition lim,_, g u(¢) = ug in (M, d). Then u, is uniquely determined by u(, as
shown in [Ambrosio et al. 2005, Corollary 4.3.3], and we shall say that u, is the EVI-gradient flow of G
emanating from ug. We recall that A-convexity on a metric space essentially means that the distributional
second derivatives are bounded from below by A along any geodesic segment in M (compare to below).
When M has nonpositive curvature, NPC, (in the sense of Alexandrov) the existence of a solution u;,
satisfying the EVI was shown by Mayer [1998] for any lower-semicontinuous A-convex functional, by
mimicking the Crandall-Liggett technique in the Hilbert-space setting.

However, in our case (M, d) will be the L>-Wasserstein space P, (R?) for the space of all probability
measures 4 on RY, which does not have nonpositive curvature (when d > 1). Still, as shown in [Ambrosio
et al. 2005], the analog of Meyer’s result does hold under the stronger assumption that G be A-convex
along any generalized geodesic ps in P>(RY). For our purposes it will be enough to consider Isc A-convex
functionals G with the property that P, ,.(R?) is weakly dense in {G < 0o}. Then the A-convexity of G
means, compare to [Ambrosio et al. 2005, Proposition 9.210], that for any generalized geodesic ps; = ps dx
in Pz,ac([RRd) the function G (p;) is continuous on [0, 1] and the distributional second derivatives on ]0, 1]
satisfy

PG
d*s
We recall that a generalized geodesic |15 connecting (1o and (1 in Pz,ac([Rd ) is determined by specifying
a “base measure” v € Pz,ac([R{d). Then u is defined as the following family of push-forwards:

s = (1 —=8)To+sT1)xv,

where T; is the optimal transport map (defined with respect to the cost function |x — y|>/2) pushing
forward v to pu; (compare to Remark 2.1).

Remark 2.8. The bona fide Wasserstein geodesics in Pz’ac([Rd) are obtained by taking v = g (the
study of convexity along such geodesics was introduced by McCann [1997], who called it displacement
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convexity). But as shown in [Ambrosio et al. 2005], the point of working with general base measures v is
that they can be adapted to the discrete variational scheme for constructing EVI-gradient flows by taking
v = u;; at the j-th time step (compare to Section 2EI).

We will be relying on the following version of Theorems 4.0.4 and 11.2.1 in [Ambrosio et al. 2005]:

Theorem 2.9. Suppose that G is an Isc real-valued functional on P(R?) which is A-convex along
generalized geodesics and satisfies the following coercivity property: there exist constants Ty, C > 0 and
s € Pa(RY) such that

(Hdz—%@tdwf—C (2-18)

Then there is a unique solution (i, to the EVI-gradient flow of G, emanating from any given o € {G < oo}.
The flow has the following regularizing effect: u, € {|0G| < oo} C {G < o0o}. Moreover, G(u;) and
eM|dG|? () are decreasing, where |dG| denotes the metric slope of G:

— +
|0G (i) := lim sup (G) =G(w)
v p d(p, v)

Remark 2.10. Many more properties of the EVI-gradient flow p, are established in [Ambrosio et al.
2005]. For example, u,; defines an absolutely continuous curve R — P,(R") (in the sense of metric
spaces) which is locally Lipschitz continuous on ]0, oo[, which is a A-contracting semigroup. Moreover,
the flows are stable under suitable approximation of the initial data and the functional G.

Under suitably regularity assumptions it shown in [Ambrosio et al. 2005] that the EVI-gradient flow
1 = pr dx furnished by the previous theorem satisfies Otto’s evolution equation (recalled in the Appendix)
in the weak sense:

Proposition 2.11. Suppose in addition to the assumptions in the previous theorem that p, has a density
p: for t > 0. Then p, satisfies the continuity equation (A-5) in the sense of distributions on R¢ x R with

v =—(3°G)(pr dx),
where 3°G denotes the minimal subdifferential of G.

We recall that under the assumptions in the previous theorem (and assuming {|dG|*> < oo} C P2.ac(R"))
the many-valued subdifferential G on the subspace P, ,.(R") is a metric generalization of the (Fréchet)
subdifferential Hilbert space theory; by definition, it satisfies a “slope inequality along geodesics’:

OG) (W) :={€ € L*(0) : G(v) = G(w) + (£, T} (x) — X) 12() + 5Ad2 (v, p)* for all v},

where 7)) denotes the optimal transport map between p and v, as in Remark 2.1. The minimal subdiffer-
ential 3°G on P2.ac(R") at w is defined as the unique element in the subdifferential 0G at ; minimizing
the L?-norm in L?(w); in fact, its norm coincides with the metric slope of G at 1. In [Ambrosio et al.
2005] there is also a more general notion of extended subdifferential which, however, will not be needed
for our purposes.
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Example 2.12. In the case when G = H is the Boltzmann entropy and u satisfies H () < oo, so that
has a density p, we have @°H)(n) = p~'Vp € L?*() and hence

[0H > (1) =1 (p)
is the Fisher information of p (2-1); see [Ambrosio et al. 2005, Theorem 10.4.17].

The following result goes back to [McCann 1997]; see also [Ambrosio et al. 2005] for various
elaborations:

Lemma 2.13. The following functionals are lsc and i-convex along any generalized geodesics in P>(R?):

o The “potential energy” functional V() := f V ., defined by a given Isc A-convex and Isc function V
on R? (and the converse also holds).

o The functional 1 — f Vyu®N, defined by a given A-convex function Vy on RN,
o The Boltzmann entropy H (u) (relative to dx).

In particular, for any i-convex function V on RY the corresponding free energy functional F ﬂv (2-3), is
Isc and L-convex along generalized geodesics if B € 10, oo].

Combining the results above we arrive at the following

Theorem 2.14. Assume given B € 10, oo] and g € P2(RY). Let E(u) be a Isc functional on P>(R?)
which is A-convex along generalized geodesics and satisfies the coercivity condition (2-18). Denote by
Fg the corresponding free energy functional, Fg := E + H/B. Then the EVI-gradient flow u; on P (RY),
emanating from Lo, of the functional Fg exists. Moreover, if B < 00, then |1, = p; dx, where p; has finite
Boltzmann entropy. In particular:

e If V is an Isc finite A-convex function on RY, then the gradient flow of F 5‘/ exists, defining a weak
solution of the corresponding forward Kolmogorov equation/Fokker—Planck equation (2-8) with
initial condition (2-9).

o If moreover E () is Lipschitz continuous on P>(RY) and B > 0 then p, has finite Boltzmann entropy
and Fisher information and the following continuity equation holds in the distributional sense on
R" x R:

ap; 1

E = EAIOI + V(orvr), (2-19)

where v, = 0°E is the minimal subdifferential of E at (1, = p; dx.

Proof. By the previous lemma, Fg is also Isc and A-convex and by Lemma 2.5 it also satisfies the
coercivity condition. Hence, the EVI-gradient flow exists according to Theorem 2.9. Moreover, by
the general results in [Ambrosio et al. 2005] Fjg is decreasing along the flow and, in particular, locally
uniformly bounded from above on ]0, co[. But, by the coercivity assumption £ > —oo on P (RY)
and hence it follows that H (u;) < co. The second statement then follows by the previous lemma and
the fact that the coercivity condition holds: by A-convexity f(x) :=v(x) + Alx|? is convex and hence
f(x) > —C|x| for some constant C, proving coercivity of v. To prove the last point first observe that
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E(n) > —A — Bd(, ito)* < oo on Po(R") by the Lipschitz assumption. Since Fg(u;) < C it follows
that H(u,;) < oo, which in particular implies that u, has a density p;. Moreover, by Theorem 2.9
|0 Fg(s)| < oo for t > 0. But since E is assumed Lipschitz continuous we have |0 Fg(u;)| < oo if and
only if |0 H (us)| < oo, which means that I (u,) has finite Fisher information (see Example 2.12). Finally,
the distributional equation follows from Proposition 2.11. O

2E1. The variational discretization scheme (minimizing movements). Recall that the proof of Theorem 2.9
in [Ambrosio et al. 2005] uses a discrete approximation scheme introduced by De Giorgi, called the
minimizing movement scheme. It can be seen as a variational formulation of the (backward) Euler scheme.
Consider the fixed time interval [0, 7] and fix a (small) positive number t (the “time step”). In order
to define the “discrete flow” u; corresponding to the sequence of discrete times #; := jt, where f; < T
with initial data u(, one proceeds by iteration: given u; € M := P> (RY) the next step u j+1 1s obtained by

minimizing the functional

1 \2
U+ 2ta’(u,u]) + G(u)

on M. The minimizer exists and is unique as long as t < 7y, where 7y only depends on A and the
constant 7, appearing in the inequality (2-18). Next, one defines u*(¢) for any ¢ € [0, T] by setting
u(t) = uj? and demanding that u*(7) be constant on ]z}, #; [ and right continuous; we are using a
slightly different notation than the one in [Ambrosio et al. 2005, Chapter 2].

The curve u, is then defined as the large-m limit of uﬁ’”) in (M, d); as shown in [Ambrosio et al. 2005]
the limit indeed exists and satisfies the EVI (2-17) and is thus uniquely determined. More precisely, the
following quantitative convergence result holds; see Theorem 4.07, formula 4.024, and Theorem 4.09 of
that same work:

Theorem 2.15. Let G be a functional on P>(R") satisfying the assumptions in Theorem 2.9 with A > 0.
Then
d* (1), u(0) < 319G (uo),

where |0G|(ug) denotes the metric slope of G at ug. If G is only assumed to be \-convex for some,
possibly negative, A then
du* (1), u(t)) < C|t|(G(uo) — inf G)

for some constant C only depending on A and T

Remark 2.16. By the last paragraph on page 79 in [Ambrosio et al. 2005] even if A < 0, one does not

172

need a lower bound on inf G if one replaces |t| with |t|'/4, as long as ug is assumed to satisfy G (u¢) < oo.

3. Proof of Theorem 1.1

3A. The main assumptions on the interaction energy E™). Set X =R" and denote by d the Euclidean
distance function on X. Throughout the paper E™Y) will denote a symmetric, i.e., Sy-invariant, sequence
of functions on X" and we will make the following main assumptions:

(MA1) The functional E N js Lipschitz continuous in each variable on (X, d), uniformly in N.
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(MA2) There exists a finite functional £ (i) on P,(X) such that
NTTEM (.. an) — EGN)| < en(w)

for a sequence of functionals €y on P,(X), converging pointwise to zero.

(MA3) The sequence E (M) is A-convex on (XV, d), uniformly in N.
Lemma 3.1. Assume that (MA1) holds. Then, under the embedding

Sy XN = Pr(X)

the sequence E™N) /N admits an extension which is uniformly Lipschitz continuous on (P1(X), dy) (and
hence on (P2(X), d»), by Holder’s inequality). If moreover, (MA2) holds then the extended functionals
converge pointwise on P(X) to the functional E, which thus defines a Lipschitz continuous functional on
(P1(X), dy) (and hence on (P(X), dy)).

Proof. If E™) is Lipschitz continuous in each variable with Lipschitz constant L, then taking the
decomposition

E(N)(xla ...,XN) - E(N)(Yh ,)’N)
= (EM(x1,x2,..c,x8) = EN (v, x0, o xw)) -+ (EN Oy yve1, xn) = ENV O, ow)),

where the right-hand side consists of N terms, gives

N
NTNEM @, xn) = EM sy S LNTY d (i, yo).
i=1

Since, E™) is assumed Sy -invariant we deduce that, for any given o € Sy,

N
NTENM Gy, oxn) = ENM G yw) | S LNV d (i, yo).
i=1
Hence, taking the infimum over all & € Sy shows that E®Y) /N is Lipschitz continuous on (X™), d(1)). By
the isometry property in Lemma 2.3, this means that we can identify E®Y) /N with a Lipschitz continuous
function fn on a subset Fy of P;(X). The desired extension property now follows from the general
fact that any Lipschitz continuous function f defined on a subset of a metric space ¥ admits a Lipschitz
continuous extension to all of Y. For example, the extension (that we still denote by f) can be taken as
an infimal convolution [Hiriart-Urruty 1980].

To prove the last statement in the lemma we assume that (MA?2) holds. Taking p := &y, it follows that
fn (o) = E(uo). By the Arzela—Ascoli theorem this implies that there exists a Lipschitz continuous
function f on (P1(X), d;) such that, after perhaps passing to a subsequence, fy — f uniformly on
compacts of P(X). By the assumption (MA2) we must have f = E and hence the whole sequence fy has
to convergence to E, which is thus Lipschitz continuous. As a consequence, the sequence €y := f — fy
is also uniformly Lipschitz continuous on P(X). Finally, fix u € P;(X) and take some sequence xy in
X" such that 8y (xy) — u in P;(X). Then, using the triangle inequality three times together with the
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uniform Lipschitz continuity of E™), ¢V) and E we have

|E(u) — NTTEM ()] < len (W) +3Ld1 (3x (xn), 1),

which, by the assumption (MA2) converges to zero, as desired (we have used the same notation EV /N
for the extended functional fy). O

The next lemma verifies that the mean free energy functional (2-10) and the free energy functional
Fg(:= E + H/pB), corresponding to the sequence E (M) satisfy the assumptions in Theorem 2.9:

Lemma 3.2. If the main assumptions hold, then the following hold for any given B € 10, oo]:

o The mean free energy functional N~'F éN) is A-convex along generalized geodesics in Py (X ™), doy)
and satisfies the following uniform coercivity property: there exist constants t,, C > 0

.....

_ 1
NTEY = —— doy (-, 80...0)" = C. (3-1)
*
o The free energy functional Fg is A-convex along generalized geodesics in P>(X) and satisfies
Fp=>—Lda(,50)* = C. (3-2)
%

Proof. The A-convexity of F éN) follows directly from the assumption (MA3) combined with first and
third points in Lemma 2.13. Moreover, (MA1) together with (MA2) implies (using Lemma 3.1) that there
exists a constant C such that

N
NTEM @y, ... xy) = —LN7' ) |xi| = C.
i=1

Using Holder’s inequality and integrating over X” gives the uniform coercivity property (3-1) when
B = oco. The general case then follows from Lemma 2.5. Next, since E is Lipschitz continuous (by
the previous lemma) the inequality (3-2) also follows in a similar manner. All that remains is thus to
check that E(u) is A-convex along generalized geodesics in P, (X). To this end we note that E(u) is the
pointwise limit on P,(X) of the functionals

MH/N_IE(N)M®N,

as follows from Proposition 3.6 below (applied to uy = u®V). For any fixed N the functional above
is A-convex along generalized geodesics (by (MA3) combined with the second point in Lemma 2.13).
Letting N — oo thus reveals that E is indeed A-convex along generalized geodesics. As a consequence,
sois Fg for any B € 0, oo] (by the third point in Lemma 2.13). U

3B. Propagation of chaos in the time-discretized setting. In this section we will formulate and prove
a discretized version of Theorem 1.1, assuming that the main assumptions hold. Let [L(()N) be a given
sequence of symmetric elements in P>(X") and o € P(X) be an element. Given a (small) “time step” t
we denote by MEJN) the discretized minimizing movement of the mean free energy functional N~' F éN)

on P (XM, d)) (2-10) emanating from MBN) and by i, the discretized minimizing movement of the
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free energy functional Fg(:= E + H/B) on P>(X) emanating from po. We recall that this means (see
Section 2E1) that, given ,u(N) € P»(X"), the next measure ,u,(ﬁ:]) is defined as the minimizer of the
following functional on P(X N )'

LIy i= e w? + L E ). (3-3)
Similarly, given u,; € P(X), the next measure u, ,, is defined as the minimizer of the following functional
on P(X):

11 1
i1 () = 5o d (o)’ + 5 Fp()

V) and wy; are well-defined according to Lemma 3.2 and Theorem 2.9 (or rather its

The sequences fi;,
proof using mmlmlzing movements, recalled in Section 2E1). We note that the sequence ,u,(jN) may (by
the third isometry property in Lemma 2.3) be identified with the minimizing movement of the mean
free energy functional F™) /N on Po(X™), d(3)), which in turn embeds isometrically to give a discrete
flow I;™ in Wo(Py(X), ).

Theorem 3.3. Assume that at time t;
: (N)
in Wo(P2(X), da). Then, at the next time step tj |
hm ((SN)*/M]H = (Su,.
in W, (N) 4 (N) _ | ®N (N)
2(P2(X), dy). As a consequence, if M is of the form My~ = Iy when t; = 0, then (5N)*M
converges to § iy in Wo(P2(X), db) for any tJ.

The last statement follows directly from induction using the first statement and the following basic

observation:
no € P2 (X) = (SN)*M?N — 8y, in Wa(Pa(X), da). (3-4)

Indeed, by Lemma 2.4 the convergence holds in P(P(X)). Moreover, setting I'g := &5, gives

/ d* (T, To) (SN )t ™ = / xPpo = / d*(Ts,,, To) (SN )wsg™
P(X) X

and hence (3-4) follows from Proposition 2.2. Thus it will be enough to prove the first statement in the
previous theorem.

3C. Proof of Theorem 3.3. We start with the following direct consequence of Proposition 2.2 combined
with Lemma 2.3:

Lemma 3.4. Let uy be a sequence of symmetric probability measures on XN and denote by T'y :=
(6n)« N the corresponding probability measures on P(X). Assume that the d-distance of 'y to a fixed

element in the Wasserstein space W,(P»(X)) is uniformly bounded from above. Then, after perhaps
passing to a subsequence, there is a probability measure I in Wy (P2(X)) such that

lim (6p)spuny =T
N—o0
in Wi(P>(X).
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We next recall the following well-known result about the asymptotics of the mean entropy, proved in
[Robinson and Ruelle 1967]; see also Theorem 5.5 in [Hauray and Mischler 2014] for generalizations.
The proof is based on the subadditivity properties of the entropy.

Proposition 3.5. Let uy be a sequence of probability measures on XN such that (y).jin converges
weakly to I" € P(P(X)). Then

liminf H™ (uy) > H(wT.
We will also use the following result, which generalizes a result in [Messer and Spohn 1982] concerning
the case when Ey is quadratic:

Proposition 3.6. Let 1'N) be a sequence of probability measures on XV such that Ty := (8x)xjin con-
verges to I' in Wi (P2(X)). If E ) satisfies the assumptions (MA1) and (MA?2) in the main assumptions
(Section 3A), then

L1 V), (V) /

1 — E = E I.
N gn oo N XN H P(X) (M)

Proof. Recall that the L'-Wasserstein distance dw, on W (Y, d) admits the following dual representation

(the Kantorovich—Rubinstein theorem [Villani 2003, page 34]):

dw,(u, v) = sup /u(u —v),
uelip;

where u ranges over all Lipschitz continuous functions on Y with Lipschitz constant 1. In the present

setting we take (Y, d) as P>(X) endowed with the d,-distance. By assumption

dw,(Ty,T) = 0. (3-5)

Using the empirical measure 8y we can identify N ~! E™) with a uniformly Lipschitz continuous sequence
of functions on (P2(X), d2), which by the main assumptions converges pointwise to the Lipschitz
continuous functional E (1) (using Lemma 3.1 applied to p = 2). Since N~ E®W) is uniformly Lipschitz
continuous we have
lim NTTEM Ty =TI)=0
N=00Jpy(x)

using the (3-5) combined with the dual representation of the L'-Wasserstein distance. Hence, all that
remains is to verify that

N—o00

lim N—‘EW)F:/ E(w)T.
P2(X) P2 (X)

But this follows from the dominated convergence theorem. Indeed, N~! E®) converges pointwise to E
on P>(X) and (by the uniform Lipschitz property) is uniformly dominated by the function A + Bd»,
which is in L(T"), since T' € W (P2 (X)). O

Next we turn to the asymptotics of the distances, establishing the following key property:
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Proposition 3.7. Assume that a sequence vy of symmetric probability measures on X" satisfies
lim (6x)«vy =6y
N—o0
in the distance topology in Wy (P2(X)). Then any sequence [y such that (5y)«Ln converges weakly to
I' € P(P(X)) satisfies

liminf - d(w, vy)? = / d(, )T ()

and equality holds if and only if (5n)«mn converges to I in the distance topology in W, (P>(X)).

Proof. Consider the isometry
1
Oyt (XM dyw) = (P(X).dw), (1. xn) > 8y = ) 8y,

defined in terms of the L2-distances. We equip the space P(P(X)) with the L?-Wasserstein (pre)metric d
induced from distance dy on P(X); i.e., we consider the subspace W,(P(X)). By Lemma 2.3

Ld(un, o) = (e, Gy)ev)’.

We now first assume that (§x ).y converges to I' in the d-distance topology in W, (P2(X)). Then the
“triangle inequality” for d immediately gives

Jim_d ()i, (Bn)vn)? =d(T, 8,)7.

Next we will use the following simple general fact for the Wasserstein distance on P(Y, d):

A, 8,)) = / d(y, Y021 (),

which follows from the fact that the only coupling between p and 8y, is the product u ® 6,,. Applied to
Y =P(X) this gives

d((BN)wtins 8y) = f d(i, v)? T (1)
P(X)

which concludes the proof using that d(8,, 6,) = d(i, v) by the general fact above. More generally, if
(6n)smn 1s only assumed to converge to I' weakly in P(P (X)), then the lower semicontinuity of the
Wasserstein distance function with respect to the weak topology instead gives

fimint v )= [ dGuv? TG,
Finally, if equality holds above, then, by the previous arguments,
lim Aoy = [ duv? TG
N=20 JueP(X) P(X)

(i.e., the “second moments of (§x ).y converge to the second moments of I') and then it follows from
Proposition 2.2 that (§y).un converges to I' in the distance topology in W, (P(X)). O
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3C1. Conclusion of the proof of Theorem 3.3. Without loss of generality we may set § = 1 and we will

thus drop the subindex 8 from the notations. We start by observing that for any fixed u in P(X) we have,
: (N)

by the defining property of that

lj+1°

Ly, ay 1, en
N‘Ij_H (l‘Llf,-_H) =< NJJ'_H (M® )7
where the right-hand side converges, by the propositions above, to J;11() as N — oo, where J; 1 (u) =

%d(u, ,uj)2 + F(w). In particular, taking p = ;41 gives

. 1 v
limsup —J;
N—o0 N J+l

() < Jje1 (1), (3-6)

where (1 is the unique minimizer of J;.
(N)

i1, We have a uniform control on

Next we consider the lower bound. By the minimizing property of
the d,-distance:

2 1
dy(Bn)amg)y ) Gw)etsy)”)” = wpeaug)) )P < C. (3-7)

Indeed, the minimizing property together with the previous bound gives
1 N N)\2 1 N
(et Gty )" = €= FM (.

Hence, the inequality (3-7) follows from the uniform coercivity property of 1 F ™), formula (3-1).

Now, it follows from the induction assumption and the triangle inequality for d that ,ugl? satisfies
the assumptions of Proposition 2.2. Accordingly, we may, after passing to a subsequence, assume that
UN = ,u,(jlzz converges as in Lemma 3.4, or more precisely that

N
@N)sptfy) =T

in Wi (P>(X)) for some I' € W,(P,(X)). It then follows from Propositions 3.5, 3.6 and 3.7 that

|
timint L7 iY) = / AT () J;41 (). (3-9)
Combining the previous lower bound with the upper bound (3-6) and using that ;4 is the unique

minimizer of Jj, then forces I' =4, ,, and

. 1
Jim 700 = T o). (3-9)

But this means that
: N) _
A}gnoo((SN)*MtHI - 8“’.7’+1
weakly in P(X) and by the equality (3-9) that

: (N) _
Jim d(@nll) 8, ) =, 8.

But then it follows from Proposition 3.7 (applied to v =4,,;) that (85)s«un converges to I' in the distance
topology in W, (P,(X)), as desired.
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3D. Convergence in the nondiscrete setting: proof of Theorem 1.1. We recall that in the previous
section we had fixed a time step 7. In this section we will emphasize the dependence on t by setting

TR () = Gn)a(uy ), T70) =8y, -
The assumptions in Theorem 1.1 imply, by the last statement in Theorem 3.3, that
lim d(I'y (), " ())=0 (3-10)
N—oo
in Wo(P(X)). Next, set

Ty (1) == Gn)(t™),  T@) =8,

where ;LﬁN) and u, denote the EVI-gradient flows of F éN) and Fjg, respectively (whose existence is a

consequence of Theorem 2.9 combined with Lemma 3.2). Consider now a fixed time interval [0, T']. For
any fixed ¢ € ]0, T[ we then have, by the triangle inequality,

d(Cn (1), T'(1)) <d(Tn (1), Ty @) +d(T'(), [T (1) +d(T§ @), I'F ().

First assume, for simplicity, that the assumption (MA3) (Section 3A) holds with A > 0. By the con-
vexity properties in Lemma 3.2 and the isometry property in Lemma 2.3 we have, using Theorem 2.15,
that d(I'y(¢), I'5(#)) < Ct (uniformly in N) and d(I'(t), I'*(t)) < ©C. Hence, combining the pre-
vious two inequalities with the convergence (3-10) and letting first N — oo and then 7 — 0, gives
limy_, 00 d(I'n (), I'(t)) = 0, which proves Theorem 1.1 when A > 0. Finally, in the case when A < 0 the
previous argument still applies, with the error O (t) replaced by O(z'/?) according to Remark 2.16.

4. Permanental processes and toric Kihler—Einstein metrics

In this section we will deduce Theorem 1.2, stated in the Introduction, from Theorem 1.1, proved in the
previous section.

4A. Permanental processes: setup. Let P be a convex body in R” containing zero in its interior and
denote by vp the corresponding uniform probability measure on P;i.e.,

1pdA
Vp = ———,,
V(P)
where dA denotes Lebesgue measure and V (P) is the Euclidean volume of P. Setting P, := P N (Z/k)",
we let Ny be the number of points in Py and fix an auxiliary ordering py, ..., py, of the Ny elements
of P;. Given a configuration (x1, ..., xy,) of points on X :=R" we set
1 KL Doty XN P
EM(xy, ... xy,) 1= 1 log D ekrporttan o), (4-1)
UESNk

which, as explained in Section 1B, can be written as the scaled logarithm of a permanent. To simplify
the notation we will often drop the subscript k and simply write Ny = N, since anyway N — oo if
and only if £k — oco. We will denote by C(u, v) the Monge—Kantorovich optimal cost for transport
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between the probability measures  and v, with respect to the standard symmetric quadratic cost function
c(x,p)=—x-p:

C(u,v):= inf—/ X py, 4-2)
Y XxX
where the y ranges over all couplings (transport plans) between p and v (see Remark 2.1).
Proposition 4.1. The main assumptions are satisfied for E™) with A = 0 and E(u) = —C (i, vp).

Equivalently, formulated in terms of the Wasserstein L*-distance

1 1 1
EG) =~ Sdwatuve? 4§ [ Pdurer. coi=5 [ pun (43)
In particular, —C( -, vp) is convex along generalized geodesics.

Proof. This follows essentially from the results in [Berman 2013b]. But for completeness we give a direct
proof here:

Step 1: (MA2) holds. First observe that

N
—1; = (N) (N)
NTNEY — Egopl <C @, (4-4)
where Et(mg denotes the tropical analog of E (V) (see formula (4-8) below). Indeed, fixing (xq, ..., xn)

and denoting by oy the element in Sy maximizing o +> e*1PeO T +X1P() we have

ekxl'17(70(1)+-..+x1'l7r70(|)(1 +0+---40) < E(N)(xl, .., xN) < N! KX Poyy+ kX1 pog )

Hence, taking the log and dividing by k proves the inequality (4-4), using that k"' N~!log N! — oo (by
Stirling, since N ~ k™). Next observe that

NTUEI (@) = 2 G, by (p) — 5 N X286 — 3 PP (). (4-5)

Indeed, rewriting x - p = |x — p|?>/2 — |p|*/2 — | p|?/2 reveals that 2N ~ lEt(rO; (x) is equal to the distance
between x and p in (XY, d()) minus two quadratic terms. Since §%d = d»), this proves (4-5). All in

all this means that assumption (MA?2) is satisfied with

2en () = |d*(w, Sn(p)) —d*(w, vp)| + VR IpI*(vp —8N<p>>‘.

Step 2: (MA1) and (MA3) hold. First recall the basic fact that if ¢, is a family of smooth convex
functions on R” and y is a probability measure on the parameter space S then ¢ := k! log i ek dy (o)
is also convex, for any given positive number &, and V¢ is contained in the convex hull of {V¢,}. In the
present setting we take S := Sy endowed with the counting measure y and ¢, (x) := x - p,, which is
clearly convex and satisfies V,, ¢, € P. Since P is convex and uniformly bounded, this concludes the
proof of Step 2. The convexity of —C (-, vp) then follows from Lemma 2.13. Equivalently, this means
that —%sz (i, vp)? is —1-convex. In fact, as shown in [Ambrosio et al. 2005] using a different argument
—%dWZ( -, v)? is —1-convex for any fixed v € P, (R"). O
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Next, we recall that the Monge—Ampere measure MA(¢) of a convex function ¢ on R" (4-4) is defined
by the property that, for a given Borel set E,

/ MA(¢) := / dn,
E (3)(E)

where dA denotes Lebesgue measure and d¢ denotes the subgradient of ¢ (which defines a multivalued
map from R” to R"). This is also called the Hessian measure; see [Villani 2003, Section 4.1.4]. In
particular, if ¢ € C2, then

MA(¢) = det(3%¢) dx,

where 32¢ denotes the Hessian matrix of ¢». We will denote by Cp the space of all convex functions ¢ on
R" whose subgradient d¢ satisfies

(0 ([R") C P

and we will say that ¢ is normalized if ¢ (0) = 0. By the convexity of ¢ the gradient condition above
equivalently means that ¢ is bounded from above by the support function ¢p of P, where ¢p(x) :=
SUPpep P~ X.
By Brenier’s theorem [1991], given u = p dx in P>(R") there exists a unique normalized ¢ € Cp such
that
MA(¢) = pdx, (4-6)

which equivalently means that the corresponding L°°-map V¢ from R” to P satisfies

(V@)spt = vp.

Given the previous proposition we can use the differentiability result in [Ambrosio et al. 2005] for the
Wasserstein L2-distance to get the following result (see Proposition 2.11 and the subsequent discussion
for the definition of the minimal subdifferential):

Lemma 4.2. The minimal subdifferential of —C (-, vp) on the subspace P ,.(R") of all probability
measures in P> (R™) which are absolutely continuous with respect to dx, may, at a given point p dx, be
represented by the L°°-vector field V¢, where ¢ is the unique normalized solution in Cp to (4-6).

Proof. Given formula (4-3) this follows immediately from Theorem 10.4.12 in [Ambrosio et al. 2005]
and the fact that if © € P; 4c(R"), then Brenier’s theorem gives that the optimal transport plan (coupling)
from R" to P realizing the infimum defining dw, (., vp)? is given by the L>-map V¢, where ¢ solves
(4-6). Since the barycentric projection appearing in Theorem 10.4.12 in [Ambrosio et al. 2005] for the
transport plan defined by a transport map gives back the transport map, see Theorem 12.4.4 of the same
work, this concludes the proof. U

4B. Existence of the gradient flow for Fg(p). Given 8 € 10, oo] we set Fg(u) :=—C(u, vp)+H(un)/B.

Proposition 4.3. The gradient flow wu; of Fg on P>(R") emanating from a given o exists for any
B €10, oo]. Moreover, for f < 0o we have that u; = p;(x) dx, where p; has finite Boltzmann entropy
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and Fisher information and p(x, t) := p;(x) satisfies the following equation in the sense of distributions
on R" x 10, oo[:
doi _ 1

i = EApt + V- (pVéy), 4-7)

where ¢, is the unique normalized solution in Cp to (4-6) and V ¢, defines a vector field with coefficients

. o
in L.

Proof. Given the previous lemma this follows immediately from Theorem 8.3.1 and Corollary 11.1.8 in
[Ambrosio et al. 2005] (the case 8 = oo has previously been considered by Brenier [2010; 2011; 2016]
by lifting the problem to the space of L?-maps from R” to R” where Hilbert space techniques can be
applied). 0

4C. Conclusion of the proof of Theorem 1.2. By Proposition 4.1 the main assumptions are satisfied.
Hence, Theorem 1.1 implies that the corresponding empirical measures converge in law, as N — oo, to
the measure u; € P>(R"), where the curve ¢ — u; is the gradient flow on the Wasserstein space P, (R")
of the corresponding free energy functional Fg, emanating from (. Finally, Proposition 4.3 says that the
gradient flow in question satisfies the evolution equation appearing in Theorem 1.2.

4D. The tropical setting. The results above are also valid when the permanental interaction energy

EMNO(xy, ..., xy,) is replaced by its tropical analog, i.e., the convex piecewise affine convex function
N
Et(rog)(xl, e, xNk) := max Z X1 Po)y -+ XN Po(Ny)- (4-8)
O'ESNk

In other words this is a tropical permanent, i.e., the permanent of the rank-N matrix (x; - p;) in the
tropical semiring over R, i.e., the set RU {—oo} where the plus and multiplication operations are defined
by max{a, b} and a + b, respectively [Itenberg and Mikhalkin 2012]. Equivalently, in terms of discrete
transport theory this means that

ESD(xy, ...y xy) = —C (B (), S5 (p))).

Passing to the tropical setting has, in particular, computational advantages. Indeed, while all known
methods for evaluating (general) permanents take exponential time, the tropical permanent above is, by its
very definition, the optimal value of a linear assignment problem and can be computed using an algorithm
of cubic-time complexity; see the discussion in [Brenier et al. 2003].

5. Outlook

In this final section we point out some relations between the limiting evolution equation appearing in
Theorem 1.2 (whose static solutions correspond to toric Kéhler—Einstein metrics) and other well-known
evolution equations. We also indicate some relations to sticky particle systems appearing at the microscopic
level (i.e., for finite N) and the complex geometric picture. These relations will be elaborated on in a
sequel to the present paper [Berman > 2018].
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5A. Relation to other evolution equations and traveling waves. In the one-dimensional case when
P :=[—a_, —a4], integrating the evolution equation for p, in Theorem 1.2 once reveals that the bounded
decreasing function u(x, t) := —0d, ¢, (physically playing the role of a velocity field) satisfies Burger’s
equation [Hopf 1950] with positive viscosity k := 7!

o = Kafu —uoyu

with the left and right space asymptotics lim,_, 1~ u(x, t) = a+. We recall that Burger’s equation is the
prototype of a nonlinear wave equation and a scalar conservation law, which is used, among many other
things, as a toy model for turbulence in the Navier—Stokes equations [Frisch and Bec 2001]. Interestingly,
the barycenter bp of the polytope P coincides, in this one-dimensional situation, with the negative of the
speed s := (a4 +a_)/2 of the time-dependent solution u in the terminology of scalar conservation laws
[Lax 1973]. Hence, the vanishing condition bp = 0, which in general is tantamount to the existence of a
stationary solution p; = p (as discussed in connection to Theorem 1.2) simply means, from the point of
view of nonlinear wave theory, that the speed s vanishes.

Similarly, the function ¢ (x, f) := ¢;(x), which in complex-geometric terms is a Kéhler potential, satis-
fies (after the appropriate normalization) the following viscous Hamilton—Jacobi equation, known as the de-
terministic KPZ equation in the literature on growth of random surfaces [Kardar et al. 1986; Hairer 2013]:

9 =k + 1(0:9). (5-1)

In the general higher-dimensional case, the evolution equation (1-13) (which is different than the higher-
dimensional version of Burger’s equation) can be seen as a dissipative viscous/diffusive version of the
semigeostrophic equation appearing in dynamic meteorology; see [Loeper 2006; Ambrosio et al. 2014;
Brenier 2011] for a similar situation in cosmology. Moreover, since

1 1
E(M)=—§a’2(u, VP)+§/IXI2M+C,

where d denotes the Wasserstein L2-distance, the evolution equation (1-13) can also be seen as a quadratic
perturbation (with diffusion) of the “geodesic flow” on the Wasserstein L>-space, compare to [Ambrosio
et al. 2005, Example 11.2.10], which in the one-dimensional case appears in connection to the sticky parti-
cle system [Natile and Savaré 2009]. As will be shown in [Berman > 2018], the large-time asymptotics of
the fully nonlinear evolution equation (1-13) for the probability density p, in R" are governed by traveling
wave solutions in R" whose speeds coincide with the negative of the barycenter bp of the convex body P:

pi(x) = p(x —bpt) +o(t), t— 00,

where the error terms o(t) tends to zero in L' (R") (and even in relative entropy) and where the limiting
profile p is uniquely determined from a variant of the Monge—Ampere equation (1-16) together with
the condition that its barycenter coincides with the barycenter of the initial data (thus breaking the
translation symmetry). In complex-geometric terms, p corresponds to a certain canonical Kihler—Einstein
metric w on X with conical singularities “at infinity”, playing the role of Calabi’s extremal metrics in
this context. More generally, as will be elaborated on in [Berman > 2018], the results above apply in
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a more general setting where the measure vp is multiplied by a density g, which amounts to replacing
the Monge—Ampere equation MA(¢) with g(V¢) MA(¢) and which from the point of view of scalar
conservation laws corresponds to a general concave flux function f (when n = 1).

5B. The microscopic picture: sticky particles in R". It can be shown that the attractive Newtonian
interaction energy in R is the one-dimensional version of the tropical permanental energy E;]Zg (X1, ..., XN)
appearing in Section 4D. In the general higher-dimensional setting it turns out that a very concrete interpre-
(N)

trop
particles perform zigzag paths with velocity vectors contained in the polytope — P generalizing the sticky

tation of the corresponding EVI gradient flow of E. ) (x1, ..., xy) on R™" can be given; in particular the
N-particle system on the real line.’> Moreover, there is a static solution to the corresponding deterministic
N -particle system if and only if the “discrete” barycenter of P vanishes,

1
N(Pl+"'+PN)—O7

which is consistent with the fact that the discrete barycenter can be interpreted as the mean velocity of
the particles. In general, any initial configuration of points (x, ..., xx)(0) is assembled, in a finite time,
into a single particle x,, namely the barycenter of {x, ..., xx}, which moves at the mean velocity above.
The results in the present paper can also be used to study the large N-limit of this deterministic system
(which can be seen as a dissipative version of the Hamiltonian particle system introduced in [Cullen et al.
2007] as a discretization of the semigeostrophic equations). But the key point of our approach is that it
allows noise to be added to the particle system. Then the role of the large N-limit of x, is played by the
volume form ., of a Kéhler—Einstein metric on the toric variety determined by the polytope P (compare
the discussion in Section 5A).

Interestingly, a similar particle system on R" appears in Brenier’s approach [2011; 2016] to the early
universe reconstruction problem in cosmology [Frisch and Bec 2001] (in connection to the so-called
Zeldovich approximation). In fact, our results can be used to validate the formal large N-limit of the
N -particle system with noise introduced in [Brenier 2016, Section 2.31.4

5C. The complex geometric picture. In this final section we provide some complex-geometric motivation
for the present paper; a more detailed account, including the relations to the Yau-Tian—Donaldson
conjecture and tropicalization, will appear elsewhere

Let X be an n-dimensional compact complex manifold. A metric g on X is said to be Kdhler—Finstein if
g has constant Ricci curvature and g is Kéhler; i.e., in local holomorphic coordinates g can be represented
as the real part of the positive definite complex Hessian d¢(z)/(9z;0z;) of a local function ¢ (z) called
the Kihler potential of g. If such a metric g exists with positive Ricci curvature, then X is necessarily a
projective algebraic variety which is Fano; i.e., the holomorphic (anticanonical) line bundle L := det(7 X)
over X is positive.

3When n =1 the dynamics is determined by the property that total mass and momentum is conserved in collisions and that
the particles stick together when they collide; see [Brenier and Grenier 1998].

4As pointed out in [Brenier 2016, Section 2.3], the formal argument used there, which is based on the classical Freidlin—
Wentzel theory, as in [Dawson and Giértner 1987], would require a Lipschitz bound on the drift.
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As shown in [Berman 2013a], a Fano manifold comes with a sequence of canonical N-particle random
point processes. The number of particles N arises as the pluriantigenera of X:

N =N, :=dimH*(X,L®), k=1,2,3,...,

where H°(X, L®*) denotes the complex vector space consisting of the global holomorphic sections of
the k-th tensor power of L. The Fano condition ensures that Ny — oo as k — oo. The local density of
the corresponding canonical symmetric probability measure ™) on XM is defined by

1 —2/k
P (z1, ..z = E|det(z1, | detar, - zwy) = det(si(z)), (5-2)
k
where det(z,...,zn,) € H 0(XNe, L®) is the Vandermonde-type determinant formed from a given
base s1,...,sy, in H 0(X, L®) and Z N, 1s the corresponding normalization constant ensuring that the

probability measure has unit mass (by homogeneity o™ is independent of the choice of base). However,
since the local density p¥)(z, ..., zx,) has singularities (for example when two points on X merge),
the normalization constant Zy, may be infinite, which means that the random point processes are only
well-defined if Zy, < 0o. Such a Fano manifold X was called Gibbs stable in [Berman 2013a], where it
was shown that the condition can be rephrased in purely algebrogeometric terms (see also [Fujita 2016]
for further developments). It was conjectured in [Berman 2013a] that this condition is equivalent to
X admitting a (unique) Kéhler—Einstein metric (which necessarily has positive Ricci curvature) whose
volume form may be recovered as the deterministic large N-limit of the empirical measures of the
corresponding random point processes.’

The motivation for the present paper comes from a dynamic approach to the latter conjecture where
one introduces the interaction energy

1

EMNO(zy, ..., zy) = ¢ logldet(z, .. L)l

which is attractive, in the sense that it tends to —oo as two particles merge. Locally, this object is
represented by a plurisubharmonic function, but in order to get a globally well-defined function on XV
one also has to fix a background Kihler metric g on X (representing the first Chern class of X) whose
volume form d 'V, then induces a metric ||-|| on L which is used to replace the absolute values above. The
point is that, if X is Gibbs stable, the canonical probability measure 1™ on X can then be represented
globally as the corresponding Gibbs measure at inverse temperature § = 1 (which is independent of the
choice of metric g),

wo _ 1 7E(Nk)dV®Nk(: 1 detl-2/% g ®Nk)
2 ZNke o Zm [[det]| Vo),

i.e., as a determinantal point process on X at negative temperature. The different zero-temperature case
was studied in [Berman et al. 2011].

5The convergence of the processes in the opposite case when the dual det(7* X) of det(T X) is positive was settled in [Berman
2013a] (the limit is then the volume form of the unique Kihler—Einstein metric on X with negative Ricci curvature, whose
existence was first established in the seminal works of Aubin and Yau).
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At any rate, even if X is not Gibbs stable one can still look at the stochastic gradient flow of E (Ni) on the
N-fold product of the Riemannian manifold (X, g). From this dynamic perspective Gibbs stability simply
means that the corresponding stochastic process has an invariant measure, to wit, ¥, Accordingly, the
natural dynamic generalization of the conjecture referred to above is that a (unique) Kéhler—Einstein
metric ggg exists precisely when the stochastic gradient flow of E™¥) admits a stationary measure and
then its volume form d Vg,
precisely, conjecturally the large N-limit of the corresponding stochastic gradient flows is described by the

can be recovered from the joint large N- and large ¢-limit of the flow. More

complex version of the evolution equation (4-7), obtained by replacing the real Monge—Ampere operator
with its complex counterpart. The latter flow is, at least formally, the Wasserstein gradient flow of a
free-energy-type functional F(u) on P,(X, g) and F can be identified with the K-energy functional on
the space of Kéhler metrics in ¢; (X) (using the Calabi—Yau isomorphism) [Berman 2013c]. Unfortunately,
the study of the latter flows is plagued by various analytical difficulties stemming from the singularities
of EVY) and the lack of convexity. For example, even in the simplest case when X is the Riemann
sphere, i.e., the one-point compactification of the complex plane C, so that E™ is simply the attractive
logarithmic pair interaction between Nj equal charges on C, the convergence of the large N-limit, for a
fixed time, is a long-standing open problem (however, see [Fournier and Jourdain 2017] for very recent
partial results).

SC1. The toric setting and its tropicalization. The complex geometric setting which is relevant to the
present paper appears when X is a toric Fano manifold, i.e., X admits a holomorphic action of the real
n-torus T such that (X, T') can be realized as an equivariant compactification of the complex torus C*”*
(with its standard T-action) [Donaldson 2008]. Such a compactification X is determined by a convex
polytope P, which has the property that under the dense embedding of C* into X, the complex vector
space HY(X, L®*) may be identified with the space of all holomorphic Laurent polynomials f(z) on C*"
of the form
fl@)= Z amz"
mek PNZ"

(using multi-index notation). In particular, introducing an ordering m, ..., my, on the integer points of
kP NZ" gives a basis sy, (2), - .-, Smy, of multinomials in H 0(X, L®*), which can be used to represent

det(zr, ..., zn) = Y (—1)¥EMOoD ), (5-3)

k
GESN

Now, the real vector space R"” makes its appearance when introducing logarithmic coordinates on C*",
i.e., as the image of the Log map

Log:C" — R", z> x:=(loglz1|%, ..., log|z.[%),

whose fibers are the orbits of the action of 7. Using this map, 7 -invariant metrics on L — X with positive
curvature may be identified with convex functions ¢ (x) on R” such that (9¢)(R") C P. In this picture
the permanental density Per(xi, ..., xy,) arises as the push-forward to R", under the Log map, of the
determinant density (5-3). In other words, the smooth convex permanental energy Er(,je\? (X1, ..., XN),
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formula (1-11), on R" is an averaged version of the singular plurisubharmonic interaction energy E ™)
on C*:

EN G, xw) = 2log | AE™ ag®Ne (5-4)

P k TNk
Similarly, its tropical version Et(rj(\,/g (x1, ..., xy) is the piecewise affine convex function on RN obtained
as the tropicalization of the Laurent polynomial det(zy, . .., zy,) on C**V¢.% Accordingly, Theorem 1.2

should be seen in the light of the well-known philosophy of replacing an elusive complex-geometric
problem by a more tractable convex-geometric one, by the process of tropicalization; see, for example,
[Itenberg and Mikhalkin 2012].

Appendix: The Otto calculus

In this appendix we briefly recall Otto’s [2001] beautiful (formal) Riemannian interpretation of the
Wasserstein L?-metric d» on P, (R"). The material is included with the nonexpert in mind as a motivation
for the material on gradient flows on P2(R") recalled in Section 2E.

The Otto metric. For simplicity we will consider probability measures of the form p = p dx, where p is
smooth positive everywhere (in order to make the arguments below rigorous one should also specify the
rate of decay of p at oo in R"). The corresponding subspace of probability measures in P,(R") will be
denoted by P. First recall that the ordinary “affine tangent vector” of a curve p, in P at p := pg, when p,
is viewed as a curve in the affine space L' (R")), is the function p on R" defined by

dt =0

Next, let us show how to identify p with a vector field v; in L%(p dx, R"), which, by definition, is the
(nonaffine) “tangent vector” of p; at p; i.e., v; € T,P. First, since the total mass of p; is preserved, we
have [ p dx = 0 and hence there is a vector field v on R" solving the continuity equation

p=—V-(pv). (A-1)
In geometric terms this means that
prdx = (F)s(podx) + (1), (A-2)

where F is the family of maps defined by the flow of V. Now, under suitable regularity assumptions, v,
may be defined as the “optimal” vector field v solving the previous equation, in the sense that it minimizes
the L%-norm in L?(p dx, R"). The Otto metric is then defined by

ey vp) =inf [ plodx = [ ployP . (A3)
v

6Incidentally, tropicalization may be interpreted as a zero-temperature limit by writing the tropical sum max{a, b} as the limit
of T~! log(e(l/T>” + e(l/T)b) as T — 0; compare to the discussion in [Itenberg and Mikhalkin 2012].
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which can be seen as the linearized version of the defining formula (2-6) for the Wasserstein L?-metric. By
Hodge theory, the optimal vector field v; may be written as v; = V¢ for a unique normalized function ¢
on R” (under suitable assumptions).

The microscopic point of view. Let us remark that a simple heuristic “microscopic” derivation of the
Otto metric can be given using the isometry defined by the empirical measure §y (Lemma 2.3). In-
deed, given a curve (x1(¢), ..., xy(t)) in the Riemannian product (X", 1¢®") with tangent vector
(dxi(t)/dt,...,dx(t)/dt) at t =0 we can write its squared Riemannian norm at (x;(0), ..., xx(0)) as

(dX1 (®) dx (t)>
dt 7 dt

where Sy (1) := % > 8y and v is any vector field on X = R" such that v(x;) = dx;(t)/dt,=o. Note that
setting p; := 8 (), the vector field v satisfies the push-forward relation (A-2) (with vanishing error term).

2
= f [v]?8y (0), (A-4)

Moreover, since passing to the quotient X"V /Sy does not effect the corresponding curve p;, minimizing
with respect to the action of the permutation group Sy in formula (A-4) corresponds to the infimum
defining the Otto metric in formula (A-3).

Relation to gradient flows and drift-diffusion equations. 1If G is a smooth functional on P then a direct
computations reveals that its (formal) gradient with respect to the Otto metric at p corresponds to the
vector field v(x) = V,(0G(p)/9p). In other words, the gradient flow of G(p) may be written as

00 _ g . (pui(x), v(x)=V, 9G(p)
at ap

(A-5)

lp=ps
In particular, for the Boltzmann entropy H (p), formula (2-1), one gets, since dG (p)/dp = log p (using
that the mass is preserved), that the corresponding gradient flow is the heat (diffusion) equation and
the gradient flow structure then implies that H (p;) is decreasing along the heat equation. Moreover, a
direct calculation reveals that H is convex on P in sense that the Hessian of H is nonnegative and hence
it also follows from general principles that the squared Riemannian norm |V H|*(p,) is decreasing. In
fact, by definition |VH |>(p) coincides with the Fisher information functional I (p), formula (2-1). More
generally, the gradient flow of the Gibbs free energy F /SV is given by the diffusion equation with linear
drift V, V,

Oor _ lepz + Vi (0 ViV), (A-6)

i B
often called the linear Fokker—Planck equation in the mathematical physics literature. The study of the
previous flow using a variational discretization scheme on P2(R") was introduced in [Jordan et al. 1998]
(compare to Section 5C1).
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THE INVERSE PROBLEM FOR THE DIRICHLET-TO-NEUMANN MAP
ON LORENTZIAN MANIFOLDS

PLAMEN STEFANOV AND YANG YANG

We consider the Dirichlet-to-Neumann map A on a cylinder-like Lorentzian manifold related to the wave
equation related to the metric g, the magnetic field A and the potential g. We show that we can recover
the jet of g, A, ¢ on the boundary from A up to a gauge transformation in a stable way. We also show
that A recovers the following three invariants in a stable way: the lens relation of g, and the light ray
transforms of A and ¢. Moreover, A is an FIO away from the diagonal with a canonical relation given by
the lens relation. We present applications for recovery of A and ¢ in a logarithmically stable way in the
Minkowski case, and uniqueness with partial data.

1. Introduction and main results

Let (M, g) be a Lorentzian manifold of dimension 1 4+ n, n > 2; i.e., g is a metric with signature
(—=1,1,...,1). Suppose a part of dM is timelike. An example of M is a cylinder-like domain representing
a moving and shape-changing compact manifold in the x-space (if we have fixed time and space variables)
with the requirement that the normal speed of the boundary is less than 1; see Section 5.

Denote the wave operator by [g; in local coordinates x = (x%,...,x™) it takes the form

O, := 3;(y/] det g|g/*d
g \/ld—( egg k)

Consider the following operator P = Pg 4 4, which is a first-order perturbation of [lg:
1

P=Py g, = ——
g4 | det g|

Here i = +/—1, A is a smooth 1-form on M, and ¢ is a smooth function on M.

(8 —iAj)y/|detg|g/* (B —iAr) +q. (1)

The goal of this work is to study the inverse problem of recovery of g, A and g, up to a data-preserving
gauge transformation, from the outgoing Dirichlet-to-Neumann (DN) A map on a timelike boundary
associated with the wave equation

Pu=0 inM. (2)

We are motivated by applications in relativity but also in applications to classical wave-propagation
problems with media moving and/or changing at a speed not negligible compared to the wave speed. We

Stefanov was partly supported by NSF Grants DMS-1301646 and DMS-1600327. Yang was partly supported by NSF Grant
DMS-1715178, an AMS Simons travel grant, and startup fund from Michigan State University.

MSC2010: primary 35R30; secondary 35A27, 53B30.
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are interested in possible stability results even though some steps in the recovery are inherently unstable.
This problem remains widely open. The results we prove are the following. First, we show that one
can recover the jet of g, A, g at the boundary (up to a gauge transform) in a Holder-stable way. Next,
we show that one can extract the natural geometric invariants of g, A, ¢ from A in a Holder-stable way.
More precisely, A recovers the lens relation £ related to g, in stable way. If we know g, the light ray
transform LA of A is recovered stably. If g and A are known, the light ray transform Lyg of ¢ is
recovered stably. The lens relation £ is the canonical relation of the Fourier integral operator (FIO) A
away from the diagonal, and the light ray transforms L; A and Logq are in fact encoded in the principal
and the subprincipal symbols of it. In fact, £ is directly measurable from A.

Since the results we prove are local or semilocal (near a fixed lightlike geodesic), and the proofs are
microlocal, we do not formulate a global mixed problem for the wave equation at the beginning but we do
consider one in Section 5. In fact, existence of solutions of such problems depends on global properties
of (M, g), one of which is global hyperbolicity, which are not needed for our weaker formulation and for
the proofs. Instead, we define the DN map up to smoothing operators only. In the case when one can
prove the existence of a global solution, the true DN map would coincide with ours up to a smoothing
error, see Section 5, and our results are not affected by adding smoothing operators.

This problem has a long history in the stationary Riemannian setting, i.e., when M = [0, T'] x My,
where (Mo, g) is a compact Riemannian manifold with boundary, and the metric is —d¢? + g;; (x)dx!dx/.
The boundary control method [Belishev 1987] and Tataru’s uniqueness continuation theorem [1995; 1999]
give uniqueness provided that T is greater than a certain sharp critical value T, as shown by Belishev
and Kurylev [1992]; see also the survey [Belishev 2007]. Stability however does not follow from such
arguments. Stability results for recovering of the metric and lower-order terms appeared in [Stefanov
and Uhlmann 1998; 2005b; Montalto 2014; Bellassoued and Dos Santos Ferreira 2011; Bao and Zhang
2014], with [Montalto 2014] covering the general case. A main assumption in those works is that the
metric is simple, i.e., that there are no conjugate points and the boundary is strictly convex (a not so
essential assumption) and the main technical tool for recovery of the metric is to reduce it to stability for
the boundary/lens rigidity problem; see, e.g., [Stefanov and Uhlmann 2005a]. For related results, we refer
to [Isakov and Sun 1992; Sun 1990]. Recently, the progress in treating the local rigidity problem allowed
results under the more general foliation condition [Stefanov et al. 2016], which allows conjugate points.
In any case, some condition is believed to be necessary for stability. It is worth noticing that all inverse
(hyperbolic) scattering problems for compactly supported perturbations are equivalent to inverse DN map
problems.

Recently, there has been increased interest in this problem or in related inverse scattering problems in
time-space. Recovery of lower-order time-dependent terms for the Minkowski metric has been studied
in [Stefanov 1989; Ramm and Sjostrand 1991; Ramm and Rakesh 1991; Waters 2014; Salazar 2013;
Ben Aicha 2015; Bellassoued and Ben Aicha 2017], and for —d¢? + 8ij (x)dxidxj in [Kian et al. 2018].
Eskin [2017] proved that one can recover g, A, g up to a gauge transformation, assuming existence of
a global time variable ¢ and analyticity of all coefficients with respect to it. The proof is based on an
adaptation of the boundary control methods and the analyticity is needed so that one can still use the
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unique continuation results in [Tataru 1999]. Stability does not follow from such arguments. Other inverse
problems on Lorentzian manifolds are studied in [Kurylev et al. 2014a; 2014b; Lassas et al. 2016]. The
inverse scattering problem of recovering a moving boundary is studied in [Cooper and Strauss 1984;
Stefanov 1991; Eskin and Ralston 2010]. The first author showed in [Stefanov 1989] that in the case
where g is Minkowski and A = 0, the problem of recovery of g reduces to the inversion of the X-ray
transform in time-space over light rays, which was shown there to be injective for functions tempered in
time and uniformly compactly supported in space. In [Lassas et al. 2017], it was shown that the linearized
metric problem leads to the inversion of a light ray transform of tensor fields. Such light ray transforms are
inherently unstable however because they are smoothing on the timelike cone. They require specialized
tools for analyzing the singularities near the lightlike cone, not fully developed in the geodesic case; see
[Greenleaf and Uhlmann 1989; 1990a; 1990b]. The light ray transform has been also studied in [Boman
and Quinto 1993; Begmatov 2001; Stefanov 2017; Kian 2016].

We describe the main results below. Let xo € M and assume that dM is timelike near x¢. Then dM
with the induced metric is a Lorentzian manifold as well and we choose (locally) one of the two time
orientations, which we call future pointing.

Let f € £'(0M) be supported near xo with WE( f) close to a fixed timelike (xq, £%) € T*0M \ 0. We
define the local outgoing solution operator f +— u, defined up to a smoothing operator, as the operator
mapping f to the outgoing solution u of

Pu e C® in M near xo, ulgpr = f mod C*°. (3)

The term “outgoing” here refers to the following. We chose that microlocal solution (parametrix) for

which the singularities of the solution are required to propagate along future-pointing bicharacteristics. We

refer to the subsection on page 1385 for more details. On the other hand, it is “local” because it solves (3)

near xo only and this keeps the singularities close enough to dM without allowing them to hit dM again.
Define the associated local outgoing Dirichlet-to-Neumann map as

AW o f = @vu—i (A, v)u)|ap. )

where v denotes the unit outer normal vector field to dM, and the equality is modulo smoothing operators
applied to f. By definition, the Aléﬁ’,c A is defined near xg only, and in fact, in some conic neighborhood
of the timelike (xo, £%’). Since the latter is arbitrary, A1

8,49
on dM but we keep it microlocalized near (xo, £%') to emphasize what we can recover given microlocal

extends naturally to the whole timelike cone

data only.

As we show in Theorem 3.1, Ag’c w is actually a WDO (pseudodifferential operator) on the timelike

loc

cone bundle near xo. The main result about A g

is Theorem 3.2: a stability estimate about the recovery
of the boundary jets of the coefficients.

Let f € £ (M) have WF(f) as above. Let u, as in (3), be the parametrix in a neighborhood
of the future-pointing null bicharacteristic issued from the unique future-pointing lightlike covector
(x0.£%) € T*M \ 0 with orthogonal projection (xg, £%). Note that the direction of (x¢, £°) and that

of the bicharacteristic might be the same or opposite. Assume that this bicharacteristic hits dM again,
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transversely, at point yo in the codirection 7° and let n° be the corresponding orthogonal tangential
projection on Ty"; OM. Then (yg,n") is timelike, as well. Let &/ and V be two small conic timelike
neighborhoods in 7*3dM \ 0 of (x¢,£%") and (yo, %), respectively. If U is small enough, for every
timelike (x, £’) € U close to (xg, £%’), we can define (y, ') in the same way. This defines the lens relation

L:U—V, Lx,&)=0.7); &)

see Figure 1. By definition, £ is an even map in the second variable; i.e., L(x, —£') = (y, —1'). If (x, &)
is future-pointing (i.e., if the associated vector by the metric is such), then (x, —&’) is past-pointing but
we can interpret (v, —n’) as the end point of the null geodesic with initial point projecting to (y, —n’) but
moving “backward” with respect to the parameter over it. This property correlates well with Theorem 4.2
since the wave equation has two wave “speeds” of opposite signs.

The map L is positively homogeneous of order 1 in its second variable. Now, for f as above, let u be an
outgoing microlocal solution to (3) near (the projection on the base of) the bicharacteristic yg issued from
(x0, £°) all the way to its second contact with dM at yq. In other words, u is a distribution defined near
yo and solving (3) there rather than just near x¢, having future-propagating singularities only. It is unique
up to a function smooth near yg; see Proposition 4.1. At this point, we assume that (xg, £%’) is not a fixed
point for £, which means that the reflected bicharacteristic does not become a periodic one after the first
reflection. This solution is constructed as a solution with the boundary removed, in some neighborhood
0/).

’

of yo. Since f is smooth near (o, n°’) that means there is no singularity of the solution u at (yg,
therefore, the singularity reflects at yg. We extend the solution microlocally over a small segment of the
reflected ray before reaching dM again; see Proposition 4.1 for details. Then we define the global outgoing
DN map AE 2. A.q
In fact, by propagation of singularities, Ag Ag f has a wave-front set in } only and we can cut smoothly

by (4) again but with the right -hand side localized to V, the projection of V to the base.

outside some neighborhood of yg. The map Ag 1s actually just semiglobal because it is the DN map
restricted to a solution near one geodesic segment connectmg boundary points. Also, it is only deﬁned up
to an operator smoothing near (xg, £°). If a global initial boundary value problem is well defined, AY e.Ag
coincides with the associated DN operator up to a smoothing operator; see Section 5. In Theorem 4.2, we
prove that Ai,l’ Ag is an FIO associated with the graph of £. In Theorem 4.3, we show that A‘Z’,l’ 4,4 Fecovers
L in a stable way, which is also a general property of FIOs associated to a local canonical diffeomorphism.

Another fundamental object is the light ray transform L which integrates functions, or more generally

tensor fields, along lightlike geodesics. We define L on functions by

Lof(y) = / Fr(5)) ds, ®)

and on covector fields of order 1 by

Lif(y) = / (F(s). 7(5)) ds. ™

where (f(y(s)), y(s)) = fj(y(s)))'/j (s) in local coordinates and y runs over a given set of lightlike
geodesics, and we always assume that supp f is such that the integral is taken over a finite interval. In
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our results below, y’s in Lo and L are the maximal geodesics through M connecting boundary points.
Unlike the Riemannian case, lightlike geodesics do not have a natural speed-1 parametrization and every
rescaling of the parameter along them (even if that rescaling changes from geodesic to geodesic) keeps
them being lightlike. The transform L is invariant under reparametrization of the geodesics and can
be considered as an integral of { f, dy) over the geodesics. On the other hand, L is not. Despite that
freedom, the property Lo f = 0 does not change. One way to parametrize it is to define it locally near a
lightlike geodesic hitting a timelike surface at s = 0, in our case, dM. Then the orthogonal projection y’(0)
of each such y on TdM (the prime stands for projection) determines y(0), and therefore y, uniquely.
To normalize the projections on 7dM, we can choose a timelike covector field Z on T dM locally and
require g(y, Z) = F1 for future-/past-pointing directions.

In Theorem 4.4, we show that given g, one can recover L A in a Holder-stable way; and if we are
given g, A, one can recover Log in a Holder-stable way. Notice that we do not require absence of
conjugate points and we do not use Gaussian beams. Instead, we use standard microlocal tools including
Egorov’s theorem. In Section 5, we consider some cases where L and Lo can be inverted to derive
uniqueness results. As we mentioned above, those transforms are unstable. The reason is that they are
microlocally smoothing in the spacelike cone; see, e.g., [Greenleaf and Uhlmann 1990b; Stefanov 2017;
Lassas et al. 2017]. Therefore, stable recovery of LA and Loq does not imply Holder-stable recovery of
A1 (up to a gauge transform) and g but allows for weaker logarithmic estimates using the estimate for
recovery of g from Log in the Minkowski case proven in [Begmatov 2001], for example. We discuss
some of those possible corollaries in Section 5. Recovery of g from L is an open problem, with some
results about the linearized problems obtained recently in [Lassas et al. 2017].

2. Preliminaries

Notation and terminology. In what follows, we denote by U and V the projections of &/ and V onto the
base dM. We freely assume that I/ and V, and therefore, U and V' are small enough to satisfy the needed
requirements below.

If £ is a covector based at a point x on dM, we denote by &’ its orthogonal projection to 7 dM. We
routinely denote covectors on 77 0M by placing primes, like &', etc., even if a priori such a covector is
not a projection of a given one.

Timelike/spacelike/lightlike vectors v are the ones satisfying g(v, v) <0, or g(v,v) >0, or g(v,v) =0,
respectively. We identify vectors and covectors by the metric. We choose an orientation in U that we call
future pointing (FP). More precisely, we choose some smooth timelike vector Z in U (identified with an
open set in the tangent bundle) and we call future pointing those timelike vectors v for which g(v, Z) > 0.
If we have a time variable ¢, for example, such a choice could be Z = d/d¢. In semigeodesic coordinates
(x® =, x) near a spacelike hypersurface, see (9) after Lemma 2.3, FP v = (v°, v’) means v° > 0. Notice
that for the associated covector (t, §) = gv, we have t < 0.

Given a timelike (x, ') € U, assume first that & is FP. Let & be the lightlike covector pointing into M
with orthogonal projection £’, identified with the vector v = g~ 1£. The geodesic Vx,g& (s) issued from
(x,v), for s > 0 will be called the FP geodesic issued from (x,&’). In Figure 1, left, v = vj,; and
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Figure 1. A tangent timelike future-pointing (FP) vector v” on the left, and a past-pointing
on the right; and the two lightlike vectors viye and vex with the same projection, pointing
to M and outside M, respectively. The FP geodesic y = y, ¢ (s) in both cases propagates
to the future but on the right, it is determined by negative values of the parameter over
it. The corresponding covectors &', & and &ex, are plotted, as well. The lens relation is

L(x, &)= (.7).

V£ (8) = y. If (x,§') is past pointing, then we choose v to be the lightlike vector projecting to v’
pointing to the exterior (vex in Figure 1, right) and take y, ¢/(s) for s < 0. By propagation of singularities,
a boundary singularity (x, §’) as above would propagate either along the FP geodesics chosen above, or
along the past-pointing ones (or both) that we did not choose. The choice we made reflects the requirement
that singularities should propagate to the future only. We call such microlocal solutions outgoing. We
borrow that term from scattering theory. In the case of the classical formulation of the Riemannian version
of this problem, this is guaranteed by the condition ¥ = 0 for # < 0.

Gauge invariance. There exist some gauge transformations which leave the local and the global versions
of the Dirichlet-to-Neumann map Ag 4 , invariant; thus one can only expect to recover the corresponding
gauge-equivalence class. To simplify the formulations, we assume that the DN map A 4,4 is well defined
globally on M. In our main theorems, we will apply this to the WDO part of Ag 44 first, and then ®
below needs to be the identity near a fixed point only. For the semiglobal one, we need ® to be identity
near both ends of the fixed lightlike geodesic only. Since the computations below are purely algebraic,
the lemmas remain true for the localized maps with obvious modifications.

We will consider two types of gauge transformations in this part. The first one is a diffeomorphism in
M which fixes dM.

Lemma 2.1. Let (M, g) be a Lorentzian manifold with boundary as above, let A be a smooth 1-form and
q be a smooth function on M. If ® : M — M is a diffeomorphism with ®|ypy = 1d, then

Ng,a,q = Norg,0v4,0%q
Here 1d is the identity map, and ®* g, ®* A, ®*q are the pullbacks of g, A, q under ®, respectively.

Proof. For any f € C°°(dM), let u be the solution of L4 4 4u =0on M withu|sps = f. Define v:= ®*u
as the pull-back of u; then a simple calculation in local coordinates shows that Lg+g ¢+ 4,0+4v = 0 and
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vlgp = f. If we write y = ®(x) as a local coordinate representation of @, then

Agaqf(y)= ’(y) (y)

axl v 8x ayk
J -
ay, i a 5 (x) Ak(x)v(x)

= i/ (x)m(m — i/ (x)(* 4) (x)v(x)

oM

= v/ ()7

oM

= Ao+g, 0% 4,0%¢ [,
oM

where v and ¥ are the unit normals in the y- and x-variables, respectively. The above calculation essentially

verifies that Ag 4 4 is defined invariantly. Therefore, Ag 4,4 = Ag*g o*4,0%q- |

Another type of gauge invariance occurs when one makes a conformal change of the metric g. This
type of gauge invariance also occurs when g is a Riemannian metric and Ag 4 4 is the corresponding
Dirichlet-to-Neumann map for the magnetic Schrodinger equation; see [Dos Santos Ferreira et al. 2009,
Proposition 8.2].

Lemma 2.2. Let (M, g) be a Lorentzian manifold with boundary as above, let A be a smooth 1-form and
q be a smooth function on M. If ¢ and  are smooth functions such that

¢lom = velom =0,  Vlom =0,
then we have
. i Ng.aq = Ne=20g.4-dy.e20(g—4,)
where q, 1= enT‘ngeTn‘p.
Proof. A direct computation in local coordinates shows that

n+2
% Lo
e Pg A’q (e 2 u) - _2‘ﬂg’A,ez‘ﬂ(q—qw)us

e VP aqeVu)y="p g, A—dyr,qU-
For any f € C°(dM), let u be the solution of Pg 4 ,u = 0 on M with u|pps = f. Setting v :=
¢"Z°%e~ 1V, we have
n=-2., _;
Pe20g,4-dy,e20(g-q)V = Pe—20g, a-dyre20(q—g,)(€ 2 Ve V1)

n+2 . n+2 —7
=e 2 PPy a_gygqle Vyy=e 2z %e ””Pg,A,quzo.

Furthermore, notice that v,—2¢¢ = Vg by the assumption on ¢; thus

cdv oy
Ae20g,a-ay.e20q—q,) ) =V 55—’ (A’ ox J)vbM

(e TPV .
:vja(e 2 e. u)—iVJ( - aw)(@ 5 gae li//u)laM

dx/
‘ 0 ) 0
:v/(—i%u—i—%)—zvhv/( —a—w])ulaM
~8
— i 2 —iv/ Ajulgpyr = Ag.agf. O
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Gauge equivalent modifications of g, A, q. It is convenient to work in semigeodesic normal coordi-
nates on a Lorentzian manifold. These coordinates are the Lorentzian counterparts of the well-known
Riemannian semigeodesic coordinates for Riemannian manifolds with boundary. We formulate the
existence of such coordinates in the following lemma.

Lemma 2.3. Let S be a timelike hypersurface in M. For every xg € S, there exist € >0, a neighborhood N
of xo in M, and a diffeomorphism ¥ : S NN x [0, T) — N such that

(1) W(x',0) =x"forallx’ € SN N;
(i) W(x/, x™) = yyr(x™), where yx(x™) is the unit speed geodesic issued from x' normal to S.

Moreover, if (xO, e, x”_l) are local boundary coordinates on S, in the coordinate system (xO, cen X,
the metric tensor g takes the form

g:gaﬁdx“@)dxﬂ—l—dx"@dx", a,f<n-—1. (8)

Clearly, gqp has a Lorentzian signature as well. If M has a boundary, then S can be dM and x" is
restricted to [0, €]. A proof of the lemma can be found in [Petrov 1969] and is based on the fact that the
lines x” = const. and x” = s are unit speed geodesics; therefore the Christoffel symbols F,‘; ,, vanish for
all i. We will call such coordinates the semigeodesic normal coordinates. The lemma remains true if S is
spacelike with a negative sign in front of dx” ® dx™ in (8) (we replace the index n by 0 below), and this
gives us a way to define a time function ¢ = x locally, and put the metric in the block form

g=—di> +g;(t,x)dx' ®dx’/, 1<i,j<n, 9)

with g;; Riemannian.

Now we use the gauge invariance of Ag 4 4 to alter g, A, g without changing the DN map. Three
types of modifications are made in the following, labeled as (M1)—(M3) respectively.

Firstly, given two metrics g and g, one can choose diffeomorphisms as in Lemma 2.1 to obtain common
semigeodesic normal coordinates. In fact, let ¥ and U be diffeomorphisms like in Lemma 2.3 with respect
to g and g respectively; then ToUlisa diffeomorphism near 0M which fixes dM. Extend UoW ! asin
[Palais 1960] to be a global diffeomorphism on M. The properties of ¥ and U ensure that the two metrics g
and (\fl o W~1)*& have common semigeodesic normal coordinates near M. Therefore, we may assume:

(M1) If (x/, x™) are the semigeodesic normal coordinates for g, they are also the semigeodesic normal
coordinates for g.

Secondly, we employ the conformal gauge invariance to replace g with a gauge-equivalent one to
obtain some identities which later will help simplify the calculations.

Lemma 2.4. Let S be either a timelike or a spacelike hyperplane near some point pg € S. Given smooth
functions ra, r3, ... on S near py, there exists a smooth function [ near pg with £ =0, d,;u =0on S
so that if V is the diffeomorphism in Lemma 2.3 related to the metric g .= et g, then

3 det(U*g) =rj, j=2.3,...,

on S near po. Here 9, = 0/0x™ with (x°, ..., x™) the semigeodesic normal coordinates for g.
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Before giving the proof of the lemma, we remark that (x°, ..., x") may not be the semigeodesic
normal coordinates for g.

Proof. The statement of the theorem is invariant under replacing g by W* g for any local diffeomorphism ®
which preserves the boundary pointwise. Therefore, we may assume that g is replaced by W*g, i.e., that
x = (x/, x™) are semigeodesic coordinates for g.

Note first that the conformal factor does not change the property of a covector being normal to S but
rescales the normal derivative and may change the higher-order ones because Yy’ may change its curvature
with respect to the old metric. More precisely, for the vector e, = (0, ..., 0, 1) we have g(ey, en) =Fl1
but g(en, en) = Fet. Therefore, for the correspondlng normal derlva‘uves we have 8,) —e 2 0y = 0p
on x" = 0. Let P,/(s) be the normal geodesic at x” € S with yx/ consistent with the orientation of §,
normalized by gA()ﬁx/(s), );/x/(s)) = F1. Then for every smooth function f,

" f()xr=0 = B Len=o f (P (6™).
For j =0, 1, the results are not affected by the conformal factor and we get
U f(@)ro = f(0), 88" f(X)r=0 = fu(x".0).
To compute the higher-order normal derivatives, we write
2V f(x') = fi P9l + it onx" =0. (10)
Under the conformal change of the metric, the Christoffel symbols are transformed by the law
I‘Jkk Fk + > 8k8 uw+ %5}‘3,-# —g,-ij;L.
In particular,
Ty =T+ 58K 0n i+ 385 0nit — gnn V¥ 10 = 85 0 — 38" 0110 (11)
Therefore, f‘,’,‘n =0 on x" = 0 and (10) reduces to
PU* f(x') = fun onx" =0. (12)

In a similar way, we may compute 8{;@* f(x’) on x™ = 0. The result is 8£ f plus normal derivatives
of f of order j — 1 and less, with coefficients depending on the normal derivatives of p up to order j — 1.
For our purposes, the exact expression does not matter.

The metric g has the form

v g0/ (bug o e gus N " ggn
ok ol e o) T T ok ol

where the Greek indices range from 0 to n — 1 (but not 7). In particular,

(W* 8k = (&ij 0 W) —

det U* g = (detdW)? det(g o ¥). (13)
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We need to understand the structure of 3’; (det d\TJ)| xn=0 now. For k = 0, we have d@l xn=0 = Id.
Notice next that

AU = (9o, ..., 0,10, 9, 0), (14)

where each partial derivative is a vector. Since by (11), 92 = —f‘,’1 , =0 for x" =0,
dp (det dW)|xn—q = 0.
To analyze k = 2, we notice first that
BV = 9,18, = 0, (800 — 28" 01 11) = —8L ptnn +--- .

where the dots represent a term involving lower-order d,-derivatives of . Using this in (14), we get

0%(det dW)|n =0 = —fnn|xn=o0.
Reasoning as above, we see that

37 (det dW)|xn—g = —07 pt|xn=o +--- . (15)

where the dots represent terms involving normal derivatives of  (possibly differentiated tangentially) up
to order j — 1.
We will analyze the normal derivatives of det(g o @) in (13) now. Since det & = e* det g, we get

9, det(8 o U) = 8, (DY et g o )
=M+ 1)u,detg + 0, detg =09, detg on IM. (16)
We used the fact that d¥ = Id on M and that 9,d¥ = 0 since du = 0 on dM. Therefore, 8% detgo =
97, detg on x" =0 for j =0, 1. . .
For the highest-order derivatives, notice that 8%@ involves 8{,_1u as its highest-order normal p-
derivative, as the arguments leading to (15) show. Differentiating (16), we therefore get
8/ det(§ o U) = 3J (DY det g o )
=(m+1)@.pu)detg+--- ondM, (17)

where the dots have the same meaning as in (15).
Using (13) in combination with (15) and (17), we get

05 (det W*@)|xn=g = (n — 1)(3} ) det g +--- . (18)

To complete the proof of the lemma, we determine the normal derivatives of y on x” =0 for j =2, ....
We get first 92 (det T &)lxn=0 = (n — ) nn|xn=0, which needs to be equal to r,, and can be solved
for pnn. Then we can determine the tangential derivatives of the latter. After that, we can solve (17) with
J =3 for pnnn, etc. To complete the proof, we use Borel’s lemma. O

Let g and g be two metrics satisfying (M1) with the two diffeomorphisms W and W respectively, as in
Lemma 2.3. Applying Lemma 2.4 to S = dM and p = x¢, we can find a metric g := e*g with u =0,
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dyit =0 on AM such that under the semigeodesic normal coordinates (x°, ..., x™) for g we have
97 det(W*g) = 9/ det(¥*g), j =2,3,...,

on dM. Notice that (x°, ..., x") are also semigeodesic normal coordinates for g by (M1).

Now consider the metrics (@ o \Tl_l)* g and g. These metrics have common semigeodesic normal
coordinates (see the argument following Lemma 2.3), which are (x°, ..., x™). In these coordinates the
choice of g yields

37 det(T* o (W o U™1)*5) = 3/ det(U*g) = 9/ det(U*g).
Thus we may replace g by (\TJ o @_1)* g and change A, g accordingly, as in Lemma 2.1 and Lemma 2.2,
without affecting A g 4,4. We therefore can assume that g and g satisfy not only (M1), but also:

(M2) In the common semigeodesic normal coordinates (x’, x™),
3/ det g(x’,0) = 8/ detg(x,0), j =2.3,....

Here we have identified the metrics with their coordinate representations under 0.
Thirdly, we make modifications to the 1-form A. Again the modification does not change the gauge-
equivalence class of Ag 4.4 due to Lemma 2.2.

Lemma 2.5. Let (M, g) be a Lorentzian manifold with boundary as above, let A be a smooth 1-form
and q be a smooth function on M. There exists a smooth function & with ¥ |gps = O such that in the
semigeodesic normal coordinates (x', x"), B :== A — d satisfy

3 By(x',0)=0, j=0,1,2,.... (19)
Proof. We can find a smooth function ¥ with
v (x',0) =0, 3Ty (x,0) =8/ A, (x",0), j=0,1,2,....
Extend it in a suitable manner so that ¥ € C°° (M) with Y557 = 0. Then B = A — d satisfies (19). O

As a result we may further assume:

(M3) In the common semigeodesic normal coordinates (x’, x") of g and g,

3/ Ap(x',0) = 8] A, (x",0) =0, j=0,1,2,....

3. Boundary stability

We choose the semigeodesic coordinates (x/, x™) near xg so that xo = 0, dM locally is given by x” =0,
and the interior of M is given by x” > 0. Let £’ be a future-pointing timelike covector in T;‘O oM at xg.
On Figure 1, the associated vector would look like v’ on the left, while the covector £ would have the
opposite time direction, like the figure on the right. Let y(x’, £&') be a smooth cutoff function with small
enough support in I/ that is equal to 1 in a smaller conic timelike neighborhood of (x¢, £%). Assume also
that y is homogeneous in &’ of order 0.
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For o
f(x) =My (x, £, (20)

and for every N > 0, we would like to construct a geometric optics approximation of the outgoing
solution u of (3) near xg in M of the form

N
. , 1
Uy (x) = e A8 Z ﬁaj(x, £). 1)
Jj=0
The eikonal and the transport equations below are based on the identity
e M peitt = 2267k (3;¢0) (k) +iA0g +2iAg ¥ ;¢ (3 —iAy) + P.

In M near x¢, the phase function ¢(x, £’) solves the eikonal equation, which in the semigeodesic
coordinates takes the form

g 0u$ 0pp + (9n9)> = 0. lun—o=x"-§" (22)
With the extra condition d,¢|yp < 0, (22) is locally uniquely solvable. Moreover, (22) implies

O (x',0) =&,(x",€")>0 forany (x, &) ecUl, (23)

where

En (X, E) 1= V=g (X', 0)Ea 5. (24)

Notice that the choice of the sign of &, makes £ a lightlike future-pointing covector, pointing into M. In
Figure 1, the associated vector v = g~ £ looks like vjy on the left.

We recall briefly the method of characteristics for solving the eikonal equation. We first determine
d¢ on x" = 0 to get (23) or the same equation with a negative square root. We choose one of them,
and in this case our choice is determined by the requirement that d¢ points into M; see Figure 1. Let
now (¢,¢/(s), px,&/(s)) be the null bicharacteristic with g,/ ¢/ (0) = X', pyg(0) = (£, €,). We think of
(x’,s) as local coordinates and set ¢(x’, s) = x’ - €. More precisely, ¢ is uniquely determined locally by
the requirement to be constant along the null bicharacteristics ¢ ¢. Moreover,

p(s) = Vxo(q(s).&). (25)

Since by the Hamilton equations, ¢’ (s) = g/ p (), we get in particular that g9 i ¢ 0; is just the derivative
d/0ds along the null bicharacteristic.

In M near xo, the amplitudes ag and aj, j =1,2,..., solve the following transport equations:
TaO :07 a0|xn=0 - Xv (26)
iTaj =—Paj_1, ajlxy,=0=0, j=>1 27

where the operator T is defined as

T:=2g7%0;¢ (0 —iAg) + Og . (28)
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We prefer to express the bicharacteristics through the geodesics
[(s) := (gx,g/(5) P (5)) = (Vx,(5), 8Vxrg/ (5)).
Then along the bicharacteristics, we have
T =205 —2i (A, p(s)) + Ogp = 2udsp™ ", (29)

with the integrating factor u given by

N

nro) =exp| =3 [ Ot g @naof el [4tson. esp@)acl. G0

The amplitudes a;, j = 0,1, ..., are supported in a neighborhood of the characteristics issued from
Xo € OM in the codirection £(xg). As a result, on some neighborhood of x¢y, we have uy solves
Puy = 0Q™N), ulap = f.

loc
Theorem 3.1. Ag’A’q

is an elliptic WDO of order 1 in U.
Proof. Given f € £'(U), not related to (20), with a wave-front set as in the theorem, we are looking for

an outgoing solution u of Pu = 0 near x9, u = f on U, of the form

u(x) = (27)" / ST (&) () . 31)

The phase ¢ solves the eikonal equation (22) and therefore coincides with ¢ there. We chose the solution
which guarantees a locally outgoing u, which corresponds to the positive square root in (24). We are
looking for an amplitude a of the form a ~ Z;’;O aj(x, &), where a; is homogeneous in the §’-variable of
degree —j. The standard geometric optics construction leads to the transport equations (26), (27). Using
the standard Borel lemma argument, we construct a convergent series for a. Then u is the microlocal
solution (up to a microlocally smoothing operator applied to f) that we used to define Ag’f 4,4+ Then
A, f =0u/ov|y. Since ¢ = x"-& on U, we get that A?’CA,q is a WDO with symbol

8,49
—i &y (x' ) — Opa|xn=o.
In particular, for the principal symbol we get
0p(Agis ) (V') = —ibn = —i V=g (X)atp. (32)

We proceed in the same way if (x, &) is past pointing.
It remains to show that if we use another locally outgoing solution #, the resulting Klé‘,’c Agq would differ
by a smoothing operator. This follows by considering v := u — # which is a locally outgoing solution

with smooth boundary data, which therefore must be smooth. We omit the details. O

We prove a stable determination result on the boundary next. Let (g, A4, g) and (g, A, q) be two triples.
Define

8=[Agiag =2 a 12wy (33)
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where, as above, Alo’C Ag and A10C _ are the local DN maps associated with (g, A, g) and (g, A,9) respec-
tively microlocally restricted to a ﬁxed conic neighborhood ¢/ of a timelike future-pointing (xg, £%) € T*U
with xg € U C M. As above, we assume that £ is future pointing and timelike for both g and g,
and that ¢/ is small enough so that it is included in the future timelike cone on 7*U for both metrics.
Therefore, in the theorem below, we need to know the DN map microlocally only near a fixed timelike

covector on T*0M.

Theorem 3.2. Let (g, A, q) and (g, A, q) be replaced by their gauge equivalent triples satisfying (M1)—
(M3). Then for any u < 1 and m > 0, and some open neighborhood Uy € U of x,

~ o
(1) SUP, gy 1y 1<m |97 (8 — &) < C57;

~ _u
(2) SUPxeTy,y|<m |07 (A —A)| < Cs2m+T;

. _u
(3) SUPyeiyyj<m 107 (@ —§)| = C827F2

are valid whenever g,2, A, g,q, g are bounded in a certain C* norm in the semigeodesic normal
coordinates near xg with a constant C > 0 depending on that bound with k = k(m, ).

Proof. We adapt the proofs in [Montalto 2014; Stefanov and Uhlmann 2005b] in the Riemannian setting.
Let 'y be a small conic neighborhood of 50’. We can assume that y = 1 on Uy x I'g. Let f be as in (20).
We restrict (x’, ') to Uy x I'g below. In addition, we normalize &’ to have unit Euclidean length (in that
coordinate system). Since d,, = —dj,, the formal Dirichlet-to-Neumann map in the boundary normal
coordinates (x’, x™) is given by

Ay () = —eHF (zxzw»(x 0, §>+Z 7@ iAn)aj(xio,@)+0(1‘N‘1>- (34)

The expression for A 744 f is similar, with ¢ and a; replaced by ¢ and G 7, respectively.

The representation (34) could be derived from (21) but since u there is an approximate solution only,
and we defined Al gAg microlocally, we need to go back to its definition. To justify (34), notice that by
[Taylor 1981, Chapter VHI 7], on the set y = 1, we have e ~1Ax" E/A}S,OCA p
A}g‘,’CA g With A = |&| and £ in (34) unit.

In the following, C denotes various constants depending only on M, y in (20), on the choice of k >> 1
and on the a priori bounds of the coefficients of P in C k Solving for d,¢ (resp. 8,,(;3) in (34) and taking

f is equal to the full symbol of

the difference we obtain

N

Iy 1 oc oc 1 1 ~ , ~ . —N—

Onp— dnp = J(AIg’A,qf A; FaAR s 2(:) 271 naj =) —i(Anaj — Anap)] + O b
j:

in L2(Up). Integrating in Up yields

~ C C
19n¢ = In@llL2(wo) = S8 S Nl o) + - (35)
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The choice of f in (20) indicates that || f'|| z1(¢y,) < CA. Thus, taking the limit A — oo yields

& — Enll L2y = 19nd — 3l L2y < C8. (36)

From relation (24) we have
16 = &°")eatp | 2y = 167 = ExlL2we) = [ Pn9)” = @) | 2y < €S- BD)

We use the following argument here and in several places below: a quadratic form h*# £, & g is uniquely
determined for £’ in any fixed-in-advance open set I' on the unit sphere. In fact, one can choose n(n—1)/2
vectors £’ in I" and then the recovery is done by inverting an isomorphism on R~ 2™, and is therefore
stable; see [Dairbekov et al. 2007, Lemma 3.3]. Therefore, (37) implies ||g — &l 12w, < CS. By
interpolation estimates in Sobolev space and Sobolev embedding theorems, we have for any m > 0 and
u <1 that

g —&llcm@y < C8" (38)

provided k >> 1 is sufficiently large.
Second, we show that the first-order normal derivatives of g and the 1-form can be stably determined
on the boundary. From (34) we have

(0n —i Ap)do — (0 —iAn)ao = e " E(Ag agf — Nz 541)

FiA@On — Ind) + Z L (Onaj — dpa;) + O(ANH) in L2(Up).
Estimate as in (35) to obtain
[ @ —iAn)ao — On =i A)ao | 2y = € (8+ 28+ 1),
which holds for all A > 0. In particular, we may choose A = 8§72 to minimize the right-hand side; then
| @n —iAn)ao = (Bn —i An)do]| 12,y < C62. (39)

In order to estimate the difference of first-order normal derivatives of the metrics, we consider the
transport equation in (26). Since y = 1 for x € Uy, it follows from the boundary condition in (26) that
dato = dqx =0 fora =0,...,n—1. Moreover, g’/ = §" in the semigeodesic coordinates; thus the
transport equation in (26) becomes

26, (0n —iAn)ao — 21 A%y + On(v/—detgong) + Q(g) =0, (40)

1
/—detg
where, as before, Greek indices range from 0 to n — 1 (but not n). Here A% := g""B Ag,and Q(g)isa
linear combination of tangential derivatives of g, which is defined as follows:

0(g) = ————0a(/—detgg®? &g,

«/7
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where we have used that dg¢ = &g in Up, B =0,...,n—1. As a consequence of (38),

0(g) — Q(3) = 0(52). (41)
Therefore, combining (39), (40) and (41) we obtain

ma n(/—detgad,d) — \/T

Notice that

o 3,(J/—detgnd) — 2i (A% — A%, = O(82).

E
2 det

—0,(/—detgd,¢) = a det gdn¢ + 03¢ =

o aB
/—detg S ang Saéﬂ

is an even function of &. Here in the computation, d,¢ is substituted by &, due to (23) and 92¢ is

calculated by differentiating the eikonal equation (22). Separating the even and odd parts in & we
conclude

En RPN _ En _ 5 zaB — 082
(2dt 0, detg 2Sn8ng Safﬂ) (2dt 0p det g ¥ Bn éaéﬂ)—O(S ), (42)

(A% =A%) = 0(87). (43)
From the odd part (43), varying & locally, we get
~ 1
||A_A||L2(Uo) < Céz2. (44)

To deal with the even part, notice (42) states that

b s
2detg Op det g anang Eabp

is stably determined of order 0(8%). As &, is stably determined on Uy, see (36), their product

&

Y det g — 5 008" bty =

1
“Peabp — 50n8" Eutp

_ 1 L . goP

5 detgan (detg-g™")Eatp
is also stably determined. Since det g is known to be stable and away from zero, it follows that dph*P
is stable where h®f := (det g)g®f. Hence, the normal derivative of g = (deth)ﬁh is also stably
determined; that is,

~ 1
[0ng — ang||L2(U0) <Céz2. (45)

Using interpolation and Sobolev embedding theorems, we obtain from (45) and (44) that for any m > 0
and pu < 1,

~ ~ “
||ang_angllcm((70) + ||A_A||Cm((70) <Cs2 (46)

provided k >> 1 is sufficiently large.
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Next we show that the second-order normal derivatives of g, the first-order normal derivatives of A,
and the values of g can be stably determined on the boundary. By (34) up to A~! we obtain

. L 1 _
|@n —iAn)ar = O =i An)ar || 2,y < C(A%84+ 182 +171).
Choose A = §~# to minimize the right-hand side. Then
. L~ 1
|@n = iAn)ar = O —i An)ar || 2,y < C8*. (47)
Consider the transport equation (27) for a;. In the semigeodesic coordinates this equation takes the form
2itn(dn —iAn)ar = —02ao +q + O(52). (48)

where O (6 %) represents the stably determined terms of order O(§ %). (In fact, a1 = 0 in these expressions
by the boundary condition in (27), but it is left here for the convenience of tracking the corresponding
terms.) From the estimates (36), (45) and (48) it follows that

~ - 1
(=Bpa0 + d3do0) + (¢ —§) = O(5%). (49)
To obtain an expression of 82a0, we differentiate the transport equation in (26) and evaluate it on Up:

8,2,a0 =

92 det ——33 1 gaBy 4 052

1 i 1
2 det —a ap — g9, 4 082
4 dot etg + 4gn goeéﬂ + ng n otéﬂ + 0(82),

where the 0(8%) terms are estimated by (38) and (46) and we have used that d,, 4, (x’,0) = 0 in (M3).
Inserting this into (49) and separating the even and odd parts in &’ gives (notice that &, = /—g*B &, g 18
an even function of £'):

1 1 1
32 det ——82dt - op —92g*h 0% 50
(4det ndetg—-—— etg 452 9g” Sa§ﬂ+4§n Saéﬂ) +(g—q)=0(5%), (50)

_sl_g B Auks +§—g°'ﬂa wAytp = 0(5%). (51)

To deal with (51), we multiply the two terms by &, and §n respectively. This is valid since &, is stably
determined in (36). By the argument following (37),

19n Aa = 00 A2y < C82.
To deal with (50), recall the following matrix identity which is valid for any invertible matrix S:
dlog|det S| = tr(S~105).
Taking S = g* and applying B,ﬁ._l we see that

3/ log(— det g% = ai_l(gaﬂang“ﬂ), j=12,....
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For j =2, it gives
Sap aﬁg""3 = 92 log(— det g%y — Ongap dng®P

The right-hand side is stably determined by (M2) and (45); we thus get on Uy that
1
2ap078"? —Zap78*" = 0(52). (52)

On the other hand, remember that the two metrics g and g have been modified to satisfy (M2); thus
by (37)

2 B 2 1~ 1 2 _
4d rgondete 4d gondetg = (4detg 4det§)a" detg = 0(9).
This together with (50) gives
1 ~ 1
(~agthasuts + 5 kuts) + a0 = 061 53)

Again we multiply the terms without the tilde by S,% and those with it by é,%, using (24) we have
(078°7 + 495" = 5% — 438 eulp = 0G).
By the argument following (37),
@8°F +4q8°") - 075° +448") = 0(6%).

Multiplying those terms without the tilde by g4, those with the tilde by gog, and then summing up in
o, B yields

(2ap 028" +4nq) — (Zap 330 +4nd) = O(5%).
From (52) we come to the conclusion that
lg—dllz2qy < C5%.
Inserting this into (53) and using the argument following (37),
1978%% =072 | L2y = €87
Putting the estimates on g, A, g together, we have established
1928 — 9221l 2wy + 19n Aa — 0 Aull 2w + g = Gl L2y < €83
As before, interpolation and the Sobolev embedding theorem lead to
1028 — 828l otz + 190 Aa — I Aull ey + 19 =l omergy < C8%

for m > 0 and u < 1. Repeating this type of argument will establish the stability for higher-order
derivatives of g, A, g on Up. O
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Figure 2. The solution u.

4. Interior stability

The semiglobal microlocal solution. We construct the semiglobal microlocal solution u sketched in the
gl

8,4.q°
timelike (xo, £%’) € T*9M \ 0 and a small conic neighborhood ¢ of it. We choose a local orientation so that

Introduction in the paragraph following (5) and used to define A We recall the assumptions. We fix a
(x0, £97) is future pointing. Then there is a unique lightlike (xg, £%) € T* M \ 0 which projects orthogonally
to (xo,£%). Let yo be the zero bicharacteristic issued from (xg, £%) extended until it hits 7*9dM again,
transversally, by assumption, at some (yg, %) with projection (yo, %) = L(xo,£%) € T*OM. Let
Y = L(U) and denote by U and V the projections w(Uf), w(V) of U and V onto the base, i.e., their
“x-parts”. Denote by I' the union of all zero bicharacteristics issued “from U/, i.e., from all future-
pointing (x, £) with x € dM which have projections on the boundary in ¢4. Let I'p := 7 (I") C M be the
projection of I onto the base; see Figure 2. We assume below, for convenience, that (M, g) is embedded
in a slightly larger manifold.

Next proposition says that the microlocal solution u used in the Introduction to define A?s Ag is well
defined.

Proposition 4.1. If U is small enough, then for every [ € E'(IM) with WE(f) € U there exists a
distribution u defined in a neighborhood of T'g so that Pu € C*®(Ty), u|ly — f € C®(U) andu|y € C*.
Moreover, u is unique up to a smooth function in I'y.

Proof. We are looking for a solution ™™ of the form (31) with f having a wave-front set in /. Past-
pointing codirections can be handled the same way. The solution is the same as in Theorem 3.1 but we
is supported

in a small neighborhood of the null bicharacteristic (projecting to a null geodesic on M) issued from

are now trying to extend it as far as possible away from dM. We know that microlocally, 2"
(x0, £9) with £° future pointing with a projection & " on the boundary; i.e., £0 = (& o’ £,(x0, £9)), where
&y is given by (24). See Figure 1. This follows from the general propagation of singularities theory but in
this particular case it can be derived from the fact that 7" in (28) has its principal part a vector field along
such null geodesics, and WF (") can be analyzed directly with the aid of (31).

Such a solution is guaranteed to exist only near some neighborhood of x¢ because the eikonal equation
may not be globally solvable. On the other hand, the solution is still a global FIO applied to the boundary
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data f. Indeed, it can also be viewed as a superposition of a finite number of local FIOs, each one
having a representation of the kind (31). We construct ™ first near dM; call it u;. Then we restrict
it to a timelike hypersurface S; intersecting the null geodesic 7 (yp) transversely and we chose S; so
that the geometric optics construction is still valid along 7 (o) until it hits S1, and a bit beyond it. We
take the boundary data at S7, and solve a new similar problem, by taking the outgoing solution (the
future-pointing cone on S is the one determined by WF(u1|s,)), etc. By compactness arguments, we can
cover the whole null geodesic (the projection of yg to the base) until it hits dM again. This construction
provides solutions (modulo smooth terms) u, . .., U, each one defined in an open set 'y, where | x Tk
covers I'g. Without loss of generality we may assume that the only intersections of the I'y’s happen
among consecutive ones. Then on Sy, near the intersection with 7 (y), we have two microlocal solutions:
Uy and Uy 41. They have the same traces on S modulo a smooth function.

Next, in their common domain of definition, u; and ug 1 coincide up to a smooth function. Indeed, the
difference v has smooth trace on Sj and it is outgoing. By the last paragraph of the proof of Theorem 3.1,
v is smooth near S.

We choose a partition of unity 1 =) ; xx near Ty subordinate to that cover and set 1™ = _ k XkUk-
The latter is a microlocal solution (i.e., a solution up to smooth errors) in a neighborhood of I'g. Indeed,
this is not completely obvious only when supp yj and supp yx 1 intersect but then ux; = uy modulo
€ and therefore, near such a point, u™ = yug + yx41Uk+1 = ux modulo C>, which is a microlocal
solution.

We use this argument several times below. This construction is similar to that in [Duistermaat 1996],
where it is shown that the Cauchy problem on a spacelike surface gives rise to a global FIO. As a result,
one gets a microlocal solution ™™ in a neighborhood of "¢ (not satisfying the needed boundary conditions
on V' yet) as a composition of a finite number of FIOs.
mc

We need to reflect '™ at V' to satisfy the zero boundary condition. We write the solution u as the sum

of the incident wave u™™ and the reflected wave u™: u = '™ 4+ u™f The construction of u"f is similar —

we start with boundary data —u™™|y on V and singularities which propagate into M into the future (the
inc

past-future orientation near V is determined by declaring the singularities of ¥ on V coming from the

ref peeds

past). We refer to (57) below and the construction following it for more details. The solution u
to be extended to a small neighborhood of the geodesics near yg reflected at ' until they leave I'g. By
choosing U small enough, we guarantee that the reflected geodesics do not hit M again.

Finally, we prove the uniqueness statement. If #; and uy are two such solutions, then v :=u1 —uy is
smooth on both U and V. A priori, v can be only singular along bicharacteristics close to yg or its reflection
from V. By the argument we used above, v must be smooth in I'g with the possible exception of some neigh-
borhood of V in M, where ™! might be nontrivial. Near V, we know v has smooth Cauchy data. An (eas-
ier) adaptation of the same argument shows that v has to be smooth near V' as well. Indeed, otherwise, for v,
extended as zero outside M, we would get that P v has singularities conormal to V' only, and the microlocal

propagation of singularities theorem then would yield that v has no singularities near yg or its reflection. [

gl
8.4,
part of the proposition shows that Ai,l Aq is defined up to a smoothing operator.

Having constructed u, then we define A as in (4) but with the so-constructed u. The uniqueness



THE INVERSE PROBLEM FOR THE DIRICHLET-TO-NEUMANN MAP ON LORENTZIAN MANIFOLDS 1401

Ai,l 44 Tecovers the lens relation L in a stable way.

)

Theorem 4.2. Under the assumptions in the Introduction, A? Ag is an elliptic FIO of order 1 associated
with the (canonical) graph of L.

Note that we excluded lightlike covectors in WF( f'). This excludes bicharacteristics (geodesics) tangent
to dM carrying singularities of u. This is where the two Lagrangians (one of them being the diagonal)
intersect. We also restricted u to the first reflection shortly after that. Without that, the canonical relations
would contain powers of £. The theorem is a direct consequence of the geometric optics construction and
propagation of singularities results for the wave equation and can be considered as essentially known.

As a consequence of Theorem 4.2, for every s, we have Ag”c 4,4 Maps H S(U) into H*~1(U) and
Ai,l’ A,q Maps HS(U) into H5~!(V). Fixing s = 1, one may conclude that the natural norms for those
two operators are the H! — L2 ones. While both operators are bounded in those norms, their dependence
on the metric g is not necessarily continuous if we stay in those norms. For Aléﬁ’,“ A.q0 We will see that the

principal symbol (and the whole one, in fact) depends continuously on g; and in fact the whole operator
gl

8,4.q
operator itself does not. This observation was used in [Bao and Zhang 2014]; see also [Stefanov et al.

does, as well. On the other hand, while the canonical relation of A depends continuously on g, the

2016] for a discussion.

Proof of Theorem 4.2. We will analyze first the map F : f + u'"|g, where S is a timelike surface as in
the proof of Proposition 4.1, and (31) for u = uj, is valid all the way to it, and a bit beyond it.

Change the coordinates x so that S = {x"” =1}. This can be done if S is close enough to M. Then
(31) with x = (x/, 1) is a local representation of the FIO F and its canonical relation is given by (see,
e.g., [Taylor 1981, Chapter VIII])

(Ve dlxn=1, E) > (X, Virglxn=1).

By (25), with the momentum p projected to 7*{x" =1}, we get that this is the lens relation £; from
U CT*OIM to T*S (instead of the image being on T*IM again).

We can repeat this finitely many times by choosing Sy, S>, etc., to get a composition of finitely many
canonical relations, starting with £7; then £, maps data on 7*S; to T*S,, etc. That composition of, say
m of them, gives the lens relation from dM to Sy,. In the final step, we need to take the normal derivative.
This shows that the map f +> d,u™™|y is an FIO of the claimed type.

To prove this for Ai,l’ 44> We need to add d,u™ . The latter has an oscillatory representation of
the same kind with a different phase; see (57). Its normal derivative on V is the same however and the
principal symbol is the same as that of 3,u"'|y/; see (58) below. O

To prove stable recovery of the lens relation £, we recall that the H! — L? norm of the DN maps is
not suitable for measuring how close the canonical relations £ and L of the FIOs A?, Ag and Ai;l’ i are.
Instead, we formulate stability based on measuring propagation of singularities. Given a properly supported
WDO R on dM near (g, n°), with a principal symbol rg, we consider A*RA, where A = Ail’ Ag By
the Egorov theorem, this is actually a WDO near (xg, &) with a principal symbol (rg o £)Ag, where A¢

is the principal symbol of AA* which depends on g. In this way, we do not recover £ directly; instead
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we recover functions of £ for various choices of r¢, multiplied by Ao. Choosing a finite number of R’s
satisfying some nondegeneracy assumption, we can apply the implicit function theorem to recover £
locally. In fact, we choose below the differential operators

(Riy={1,»%...,y" "1, 8/0)y°,...,9/0y" !} (54)
Theorem 4.3. Let (y°,...,y" 1) be local coordinates on dM near yo. Let
n—1 . )
Z IA*y/ A= A*y AMlgzwy»r2@w) <8, IIAN"A = A" Al g2@y—12@w) < 6.
=0
’ (55)
n—1 9 _ 9 ~
> A*—.A—A*—.AH <3,
izo dy/ W 3y —L2U)
with A = A?A P A = A% _ . Assume that (g,4,q9) and (g, Z,q) are e-close to a fixed triple

. . g,4, . . . .
(go, Ao, qo) in a certain C k norm in the semigeodesic normal coordinates near xo and near yo. Then
there exist k > 0 and j € (0, 1) so that

(L=D)(x.&)| = C8"—g(§.&) forall (x.§) €U, (56)
if U and & > 0 are small enough.

A few remarks:

(a) The square-root term is just a homogeneity factor.

(b) The cotangent bundle T*dM is not a linear space; therefore the difference £ — £ makes sense in
fixed coordinates only.

(c) The norms in (55) are the natural one since the operators we subtract there are WDOs of orders 2
and 3, respectively.

(d) The norms in (55) are equivalent to studying the quadratic forms (Af, RjAf) — (K [ R; A ).

(¢) One could reduce the number of the R;’s to 2n — 2; in fact, Rg = 1 in (55) is not needed, as it
follows from Remark 4.8, since we can recover 1’/n, and use the fact n = (17, n,) is a null covector.

We prove Theorem 4.3 at the end of this section.

Stable recovery of the light ray transforms of A and q. Let, as in the Introduction, £° € Ty, M \ 0 be
the future-pointing lightlike covector whose projection on 7*9M \ 0 is the timelike covector £%’ as in the
definition of the semiglobal DN map. Let yp := y,, g0, be the lightlike geodesic issued from (xo, & 0)
which intersects M at another point yo. Let V' be a neighborhood of yo containing all endpoints of
future-pointing geodesics issued from ¢/. Choose and fix any parametrization of the lightlike geodesics
close to yo by normalizing &. This defines a hypersurface Uy in . The theorem below holds if ¢/ is a
small enough neighborhood of (x¢, £%’), and therefore U is small enough, as well. Then L and Lg are
well defined on Up.
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Theorem 4.4. Fix a Lorentzian metric g and (xg, £°) satisfying the assumptions above. Let (A, q) and
(A q) be two pairs of magnetic and electric potentials. Define § := ||Ag Aq A?,Z,q |z @)—L2v)-
Then:

(a) Forany u <1 and m > 0, the following estimates are valid for some integer N whenever g, A, A, q,q
are bounded in a certain C* norm:

IL1(A— A) = 27N || e gz < C8H.

(b) Under the a priori condition || A — A”CI(M) < 81 for some §1 > 0, forany 0 < u < ' and m > 0,
the following estimate is valid whenever g, A, A ,q,q are bounded in a certain C k norm:

1Lo(q = Dllem @y < CE* +87).

If there are no conjugate points along yg, the proof can be done using a geometric optics construction
of the kind (21) but with a different phase in (21) all the way along that geodesic and taking the normal
derivative in V. Since we do not want to assume there are no conjugate points along yo, we will proceed
in a somewhat different way.

The fact that we cannot rule out the case N % 0 based on those arguments can be considered as a
manifestation of the Aharonov—Bohm effect. If A and A are a priori close, then N = 0.

We start with a preparation for the proof of the theorem. Consider first the geometric optics parametrix of
the kind (31) of the outgoing solution u like in the previous section. We assume that the boundary condition
f has a wave-front set in the timelike cone on the boundary, and for simplicity, assume that it is in the future-
pointing one (7 < 0 in local coordinates for which d/0¢ is future pointing). Assume at this point that the con-
struction is valid in some neighborhood of the maximal yy. We microlocalize all calculations below there.
All inverses like D1, etc., below are microlocal parametrices and the equalities between operators are mod-
ulo smoothing operators in the corresponding conic microlocal neighborhoods depending on the context.

The construction is the same as that in the previous section, but this time the outgoing solution u is
constructed near the bicharacteristic issued from (xg, £%’) all the way to yo. Since the solution can reach the
other side of the boundary, we need to reflect it at the boundary to satisfy the zero boundary condition. We

inc and the reflected wave u'™f: u = u'™® + u'f where

uinC(x) — (2n)—n/ eiq)(x,é’)(a})nc +ai1nc + RinC)(x’ Sl)f(é./) dfl,

write the solution u as the sum of the incident wave u

(57)
uref(x) — (27_[)—}1/ ei¢ref(x,§") (a{)ef + arlef + Rref)(x’ %./)f(é./) dé_./
Here the phase function ¢™ solves the same eikonal equation as ¢ does but satisfies the boundary condition

™|y = ¢. It differs from ¢ by the sign of its (exterior) normal derivative d¢/dv = —3¢™ /dv >0 on V.
The amplitudes are of orders 0 and —1, respectively, and satisfy

Tincaglc — 0’ mC|U =y,
ref ref ref nc
T™ay =0, |V——a1 lyv,
l-Tincainc _ Pamc mC|U — 0

Tref ref _P aref ref | v = 1nc | v,
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where T and 7" are the transport operators defined in (28), related to the corresponding phase function,
and the remainder terms are of order —2. Replace A and A with their gauge-equivalent field satisfying
(M3) on V. This does not change their light ray transforms. A direct computation, which can be justified
as (34), yields

NSy f =0 / e PED (21(3, 9)ail® + 2i (3y)al® + 3y (@i + afh) +a_y) £ (&) dE',  (58)

where a—1 is of order —1 and ¢ and the amplitudes are restricted to x € V.

The expression (58) allows us to factorize Ai,l’ Aq 38 A‘:;l’ Ag= 2 No D modulo FIOs of order 0 associated
with the same canonical relation, where Df is the trace of u'™ on V (a “Dirichlet-to-Dirichlet map”)
and Ny is the DN map Ag’fo’o but localized in V. Note that replacing A and ¢ in Ny by zeros or not
contributes to lower-order error terms. Let Do be the operator D related to A =0, ¢ = 0. Let Ny 1
and Dy ! be microlocal parametrices of those operators which are actually parametrices of the local
Neumann-to-Dirichlet map and the incoming Dirichlet-to-Dirichlet one from V' to U. Then

Dy'Ny'AE

e Aqg = 2D0_1D mod S~! (59)

is a DO of order 0.
In the next lemma, we do not assume that the geometric optics construction is valid along the whole yq.

Lemma 4.5. The operator D, INO_ 1 Ai,l Ag is a WDO of order 0 in U with principal symbol

2expliL1A(yxe)} (60)
where yy: g is the future-pointing lightlike geodesic issued from x' in direction & with projection &',
Proof. By (59), we need to find the principal symbol of D ID.

The transport equation for ai(;‘c is

[2¢7%(3;0) (B —iAx) + Tglai =0, ali|ly = 1.

As explained right after (25), g/*(d j¢)0 is the tangent vector field along the null geodesic yy g .
Therefore, with I'(s) := (yx,¢/(5), gVx,&/(5)), as before, on the set y =1 we get ag‘C = u; see (30). Thatis,

ai(;“?(r(s)) = exp{ —%/0 Ogp)(T'(0)) da} exp{i /0 Ay o Vx’,&’(UW,’f/,g/(U) do; . 61)
Take s = 5(x,§) so that y,/ ¢/ (s) € V to get

(ag®o£)(x, &) = exp{—3 L(Ogp)(x', §) +iL1 A(X, £},
where we use the coordinates (x’, ') to parametrize the lightlike geodesics locally, and the definition of
L(Og¢) is clear from (61).
To construct a representation for Dy 1 note first that when A = 0, the term involving L1 A is missing

above. We look for a parametrix of the incoming solution of Ogu = 0 with boundary data u =/ on V
with WF(h) C V of the form

u(x) = (27) " / FPEEp(x ) £ () dE (62)
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where ¢ is the same phase as in the first equation in (57) and f, not related to (20), depends on / as
below. The amplitude b solves the transport equation along the same bicharacteristics (with different
coefficients since A = 0, ¢ = 0) with the initial condition

bly =a™|y,

where a'™ is the full amplitude in the first equation in (57). Restricted to V, the map f — u|y is just Df.
Then to satisfy u = & on V, we need to solve Df = h, i.e., to take f = D~ 'h microlocally.

To illustrate the argument below better, suppose that we are solving the ODE
y'+ay=0 y0) =1,
from ¢ =0to ¢ = 1, where a = a(t). Then we solve

yi+aiy1 =0, yi(1)=y(),

where a; = a;(t). A direct calculation yields

t t
y(l)ZeXp{—/O a(S)dS}, yl(t)zeXp{—/l al(S)dS} y().

In particular,
1
y1(0) = exp{ — / (a1(s) —af(s)) ds} .
0
We apply those argument to the transport equation to get

blu = expliLi A(yeg)}.
Then
D3\ Df = (21)" / 'E expliL1A(yye)} f(E) dE.

This proves the lemma under the assumption that the geometric optics construction is valid in a neigh-
borhood of yy.

To prove the theorem in the general case, we use the partition argument we used in Proposition 4.1.
Let S1,..., Sk be small timelike surfaces intersecting ) in increasing order from U to V so that the
geometric optics construction is valid in a neighborhood of each segment of yg cut by two consecutive
surfaces of the sequence {U, S1, ..., Sk, V'}. This determines Dirichlet-to-Dirichlet maps D; from U
to S1, then Dy, from S to S, etc., until Dy 41 from Si to V. Then D = Dy Dy --- D1. Similarly,
Do = Doy g+1Dox - Do,1. Then (59) is still valid and takes the form

—1p7—1 8l —1 -1 -1 -1
Do 'No Ay 4 =2D01 Dy Dogy1 D1 Di - Dy mod S71
By the first part of the proof, D ,16 +1DPk+11s 2 WDO on V' with principal symbol exp{iLng)A}, where
Lng) is the light ray transform L restricted to geodesics between S and V. Then we apply Egorov’s
theorem, see [Hormander 1985b, Theorem 25.2.5], to conclude that D(TIIC(DO_IIC_HDkJrl)D;C is a YDO
-1 ’ ?

with a principal symbol that of D . | Dg41, pulled back by L 11, the canonical relation between Sk
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and V, multiplied by the principal symbol of D Ilc Dy.. The result is then (60) without the factor of 2 with
the integration between Sy (through Sj 1) to V. Repeating this argument several times, we complete
the proof of the lemma. O

Stability of the light ray transform of the magnetic field.
Proof of Theorem 4.4(a). We have

Y

| D5 Ny (A A% g,;{,qHHl(U)eLz(V) = Cs. (63)

g. 4.9 gAq)HHl(U)
Ai] 1 (}). By Lemma 4.5, R is a WDO in U of order 0 with principal symbol

ro(x,§) = 2expliL1(A— A)(yx )},

and we have || R|| g1y < C3, by (63). We need to derive that rg is “small” in U, as well. We essentially
did that in the proof of Theorem 3.2. Choose f as in (20). By [Taylor 1981, Chapter VIIL.7], on the set
¥ =1, we know e "*¥"¥ R f is equal to the full symbol of AL?’CA’Q with A = |€] and £ in (34) bounded,
say, unit. Therefore,

g,4.q9

1 1
Set R:=Dy'Ng ' (A%, —

ro(x’, €)= e A ERE L O(1/2) (64)
in C* for every k. Since | fllz2=C and || f| g1 ~ A, (63) yields
Iro(-.ENlg1 )y < CAS + C/A,

uniformly for £ in some neighborhood of £%’. With a little more effort one can remove A from C A§ but
this is not needed. Take A = §~2 to get

lexptiLa (A= ) (e 1 ary < €52

Using interpolation estimates, we can replace the H ! norm by any other one at the expense of lowering
the exponent on the right from % to another positive one, if k in Theorem 4.4 is large enough. Since
le’? — 1] < & implies |z — 27 N | < Ce for some integer N, this proves part (a) of the theorem. |

Stability of the light ray transform of the potential.

Proof of Theorem 4.4(b). First, we will reduce the problem to the case A=A For A i A? AG
we get a representation as in (58) with a principal symbol with seminorms 0(8“ ), snfce 3ve can use
interpolation estimates to estimate the higher derivatives of A—A. Apply a parametrix (Ai, A q)_l to that
difference to get a WDO Q of order 0 microlocally supported in ¢/. If the geometric optics construction
is valid all the way from U to V, we get as in the proof of (a) that O f = O(8!' /) + O(1/A) in H'. This
implies the same estimate for H (/\il — Ag 4 q) f H 12+ In the general case, we can prove the same

estimate as in the proof of (a). We will use this later and for now, we assume A=A

Lemma 4.6. The operator DNy LA AE

g.A.q 2.4.) 18 a WDO of order —1 on U with principal

symbol
2[Lo(@ =) oy e (65)

where Yy ¢ is the future-pointing lightlike geodesic issued from x" in direction § with projection &'.
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Proof. Assume first that the geometric optics construction is valid in a neighborhood of the whole yg. In
the amplitude
—2i(pp)ag® —2i(dvp)al® + dy(ag® +ag') +a—1

in (58), the terms —2i (8v¢)a3‘° and 81,(61'})“C + af)ef) do not depend on g; see (61). The other two terms
depend on ¢ but they are of different orders. Therefore,

(Ai,l’A’q _Ail,A’q)f — (27_[)—71/ ei¢(X,S’) (_2l(av¢)(dllnc _ailnC) + (a—l _&_1))f(§-/) dé/lV- (66)

The order of the FIO above is zero. As in the previous proof, we can represent this as a composition of
2Ny with the operator D — D (the difference of two such Dirichlet-to-Dirichlet maps):

_ A4

el
A 8,49

A = 2No(D — D) (67)

modulo FIOs of order —2. That operator D — D is an FIO with a symbol, compare with (66),
o(D — D) =—2i(@" —a™) + a_,, (63)
with a_, of order —2.

To compute ailnc, recall the transport equation for ailnC

[267%0;¢ (0 — iAg) + Ogpla™ = iPail®, ™|y =0, (69)
where
inc inc

. inc . .
iPay  =iPg g0ay +iqag .

The first term on the right is independent of g. By (29), (30), with I'(s) as in (61), we get

inc _ ia})nc g 1 inc inc
ai“(I'(s)) = 5 [Pg,4,0a¢ +qay ]ol(0)do
0

inc

+ inc K} ’ (70)
) 1 inc
= > /0 [ﬁPg}A,an +q} OF(U) do.
0

The potential g depends on x only, so g o I'(s) = g o y(s). In (70), only the last term depends on ¢ and is
an integral of g over lightlike geodesics multiplied by an elliptic factor. Note that the integral, as well as
ailnc, are homogeneous of order —1 in &', as they should be.

We go back to (68) now. Using (70), the terms involving Pg 4,0 and P 2. 4.0 cancel below and we get

o(D—=D)oL=ialLo(G—q)+a—s, (71)

where a_; is a symbol of order —2, different from the one above.
Similarly to (59), we have

DTINGY(AY . — A%, y=2D"'(D— D) mod S~2. (72)

8,44 8,49
Therefore, we need to compute the principal symbol of 2D_1(5 — D). Let R be a YDO in U with
principal symbol r_; given by (65). Then, in &, DR is an FIO of the type (62) with x € V' with the
same phase function and a principal amplitude bg solving Thg = 0, bo|y = r—1. By (29), the solution
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restricted to x € V is given by ur—; o £L7!|y. Recall that o = aglc. By (71), this is 26 (D — D) modulo
symbols of order —2. Therefore, DR = 2(5 — D) modulo FIOs of order —2. This proves the lemma
under the assumption that the geometric optic construction is valid along the whole yg.

In the general case, we repeat the arguments of Lemma 4.5. We represent D and Dasa composition
D = Dy --- Dy, and similarly for D. We will do the first step. Consider 2(D2D1)~ (D2 D1 — D, Dy).
We have

2(D2D1) ™ (D2D1 ~ D2D1) =2D7' Dy (D2~ D2) D1 + Da(Dy — Dy))
= D{'RyDy+ Ry =D 'RyD1 + Ry

modulo FIOs of order —2, where R; = 2Dj_1(5j — Dj), j = 1,2. We apply Egorov’s theorem to
Dl_1 R, D to conclude that it is a WDO on U with a principal symbol equal to the sum of two terms as in
(65) with L taken over the geodesic segments between U and S, first, and S and S, second. The sum

is equal to (65) with L¢ taken over the union of those segments. Repeating this argument to include D,
etc., completes the proof of the lemma. O

We finish the proof of part (b) as we did that for part (a). Set

N [ gl
R=D""N, (Ag,A,q_Ag,A,q)~

It is a WDO of order —1 rather than of order O as in (a). The analog of (63) is still true. If, as above, r_
is the principal symbol of R, then by Lemma 4.6,

r1(x\€) = =2i[Lo(@— @) o yw g = 2T ERS +0(1/1)
with f as in (20); compare with (64). Then
1 (- e @y < CA?6+C/A.
Choose A = 673 to get [r—1(-. &) lg vy < C§85. This completes the proof of the theorem. |

Proof of the stable recovery of the lens relation.

Proof of Theorem 4.3. We use the notation above. Recall the remark preceding Theorem 4.3 above. The
operator A* PA is a WDO with a principal symbol (pg o £L)A¢g. Take p = po = 1 as in (54) to recover Ag
first. Knowing the latter, we recover p; o £ for j =1,...,2n —1; see (54). That gives us (y,7’) in (5) as
functions of (x, &’). Therefore, we reduce the stability problem to the following: show that the principal
symbol of a WDO A of order m is determined by A : H™ — L? in a stable way which is resolved by the
lemma below, see also (35), (36). Note that the lemma is a bit more general than what we need since
{P;} are simple multiplication and differentiation operators.

Lemma 4.7. Let Q be YDO in R" with kernel supported in K x K, where K C R" is compact. Let gy,
be its principal symbol homogeneous of order m. Then

lgm (. Oz < CIEM QI gmr2
forall £ # 0 with C > 0 depending on K only.
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Proof. Take f = e'*€ y(x), where y € C§*° equals 1 in a neighborhood K. Then for x in a neighborhood
of K, we have Q f(x) = € (gmm(x, ) 4+ r(x, §)) with r € S”~1. We have

B <l < clem
c — H"m =
for |£| > 1. Therefore, for such &,
Cillofll2 _ [gm. O _C2
I N 016 2 €D
Take the limit |§| — oo along radial rays to complete the proof. O

We complete the proof of Theorem 4.3 with the aid of Lemma 4.7. We recover first the L2-norms with
respect to x of £(x, £) — L(x, &) uniformly in £ (in fixed coordinates); we can choose y = 1 then. Using
standard interpolation estimates, we can estimate the L% norm of £(x, §) — £(x, £) with i < 1 in (56),
using the a priori bounds on g and g in some C k k> 1, which imply similar bounds on £ and L. O

Remark 4.8. The symbol A¢ can be computed. Since we do not use this formula, we will sketch the
proof only. Using Green’s formula, as in the proof of [Stefanov and Uhlmann 1998, Proposition 2.1], we
can show that 2Ny, = D* A, where = stands for equality modulo lower-order terms, and Ny, is N above
with the subscript V indicating that it acts microlocally in that set. The same proof implies that A* is the
DN map associated with the incoming solution, i.e., the one which starts from V microlocally and hits /.
Therefore, A* = 2Ny, D ™!, where Ny; now acts in I. Those two identities and Egorov’s theorem imply
Ao = —4(&, o £)&,, where &, is the function defined in (32).

5. Applications and examples

We start with a partial but still general enough case. We follow [Hormander 1985a, §24.1]. Let M be
a Lorentzian manifolds with a timelike boundary dM. Assume that 7 is a real-valued smooth function
on M so that the level surfaces ¢ = const. are compact and spacelike. For every a < b, the (compact)
“cylinder” M, = {a <t < b} (assuming [a, b] is in the range of ¢) has a boundary consisting of the
spacelike surfaces ¢ ~!(a), t—1(b) and IM N M, which intersect transversely. This is a generalization
of [0, T] x  in the Riemannian case. By [Hormander 1985a, Theorem 24.1.1], the following problem is
well posed:
Pu=0 inM,  uli<a=0, ulgy=f

with f € H¥(OM), s > 1, f =0 for t < a, with a unique solution u € H¥(M) vanishing for ¢ < a.
Moreover, the map f + u is continuous. Then the Dirichlet-to-Neumann map Ag 4, defined as in (4),
is well defined.

Let xo € Up € U C dM be as in Theorem 3.2. Let y be a properly supported ¥DO cutoff of order 0
localizing near some timelike covector over xg € Up. Since there is a globally defined time function, there
are no periodic lightlike geodesics. Then yAg 4,4 x can be taken as A}g‘,”c Ag and Theorem 3.2 applies. If
we know a priori that Ag 4.4 : H (10)(3M ) — L2(dM) is continuous, where the subscript (0) indicates

loc by Ag. 4,4 in (33) and therefore, in Theorem 3.2.

functions vanishing for = 0, then we can replace A 2.A.q
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Figure 3. The DN map, with g Minkowski, on the lateral boundary of the cylinder
determines a potential and a magnetic field up to d¢ inside the cylinder but outside the
two characteristic cones.

Similarly, with suitable WDO cutoffs y; and y», we can take A?’ Ag = X1A g, 4,4 x2, under the
assumptions of Theorem 4.4. And again, if we know that Ag 4.4 : H (10)(8M ) — L?(dM) is continuous,
we can remove the cutoffs. The results with the cutoffs are actually stronger.

Some special subcases are discussed below. They recover and extend the uniqueness results in [Stefanov
1989; Ramm and Sjostrand 1991; Ramm and Rakesh 1991; Waters 2014; Salazar 2013; Ben Aicha 2015;
Bellassoued and Ben Aicha 2017], and some of the stability results there. Using the results in this paper
with the support theorems about the light ray transform in [Stefanov 2017; RabieniaHaratbar 2017], we
can get new partial data results.

Example 5.1. Let ¢ be a unknown potential but assume that the metric and the magnetic fields are
known. Restrict the DN map to M, for some a < b. Then we can recover Log in a stable way as in
Theorem 4.4 over all timelike geodesics intersecting the lateral boundary transversely at their endpoints.
If g is real-analytic, then we can apply the results in [Stefanov 2017] to recover ¢ in the set covered by
those geodesics under an additional foliation condition. Note that in contrast, the results in [Eskin 2017]
require A and ¢ to be analytic in time.

Example 5.2. In the example above, assume that g is Minkowski, and M, = [0, T] x © for some
bounded smooth 2 C R". By Theorem 3.2, we can recover L1 A and Log over all lightlike geodesics
(lines) [; 9 ={(t,x) = (s,z+50):s €R}, (z,0) e R" x S”~1 not intersecting the top and the bottom of
the cylinder. By [Stefanov 2017], we can recover ¢ in the set covered by those lines. By [RabieniaHaratbar
2017], we can recover A up to d¢, ¢ =0 on [0, T'] x IR in that set as well.

For example, if €2 is the ball B(0, 1) = {x : |x| < 1}, the DN map recovers uniquely ¢ and A, up to a
gauge transform, in the cylinder [0, T']x B (0, 1) with the upward characteristic cone with base {0} x B(0, 1)
and the downward with base {7’} x B(0, 1) removed; see Figure 3. If T < 2, those two cones intersect;
otherwise they do not but the result holds in both cases. This is the possibly reachable region from
[0, T'] x 9€2; thus the results are sharp since no information about the complement can be obtained by the
finite speed of propagation.
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This extends further the uniqueness part of the results in [Stefanov 1989; Ramm and Sjdstrand 1991;
Ramm and Rakesh 1991; Waters 2014; Salazar 2013; Ben Aicha 2015; Bellassoued and Ben Aicha 2017].
Using the stability estimate in [Begmatov 2001] about L, and the logarithmic estimate for L; in [Salazar
2014], we can use Theorem 4.4 to recover the results in [Salazar 2014]. One important improvement
however is that for uniqueness, we do not assume that A and ¢ are known outside [0, T], or that T = o0
because the uniqueness results in [Stefanov 2017; RabieniaHaratbar 2017] do not require the function or
the vector field to be compactly supported in time.

Example 5.3. A partial-data case of Example 5.2 is the following. Let I' C 92 be relatively open, and
assume that 02 is strictly convex. Assume that we know the DN map for f supported in [0, T'] x T, and
we measure A f there, as well. Then we can recover ¢ (for all n > 2) and A for n > 3, up to a gauge
transform, in the set covered by the lightlike lines hitting [0, T'] x 2 in [0, T'] x I" at their both endpoints.
When n = 2, the recovery of A up to a potential d¢ requires that if we know L1 A for some lightlike /; g,
we also know it for / z,—6, see [RabieniaHaratbar 2017], and this is the reason we restricted n to n > 3.
Those local uniqueness results for the DN maps are new.

Example 5.4. In a recent work [Bellassoued and Ben Aicha 2017], an inverse problem for the wave

operator
P:=0%>+a(t,x)d; — A +b(t,x)

with real-valued a, b is studied. The coefficient b causes absorption. We do not restrict A and ¢ to be
real-valued, so we can take

A= (%a(z,x),o, .. 0) q= —%iata(t,x) +b(t, x);

then P in (1) is the same as the one above. Then Theorem 4.4 proves unique recovery of A, g up to the
gauge transform A — A —dy with ¥ =0 on [0, T] x dR2. Since A is restricted to the class of covector
fields with spatial components zero, we must have ¥ = 1 (¢). However, then ¥ = 0 for x € Q2 implies
Y = 0. Therefore, the logarithmic and the double logarithmic stability estimates in [Bellassoued and
Ben Aicha 2017] for a and for b which are about the DN map can be obtained by Theorem 4.4 combined
with the stability estimates in [Begmatov 2001; Salazar 2014]. We can get new uniqueness results however
with partial data as in the previous examples. In the Riemannian case studied by Montalto [2014] we can
allow an absorption term as well to obtain, up to a gauge transform, stable recovery of a Riemannian
simple metric in a generic class, a magnetic field, a potential and an absorption term from the DN map.
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BLOW-UP CRITERIA FOR THE NAVIER-STOKES EQUATIONS
IN NON-ENDPOINT CRITICAL BESOV SPACES

DALLAS ALBRITTON

We obtain an improved blow-up criterion for solutions of the Navier—Stokes equations in critical Besov
spaces. If a mild solution © has maximal existence time 7* < oo, then the non-endpoint critical Besov
norms must become infinite at the blow-up time:

zl#rqu llue( -, t)IIB;é+3/p(R3) =00, 3<p.q<oo.

In particular, we introduce a priori estimates for the solution based on elementary splittings of initial
data in critical Besov spaces and energy methods. These estimates allow us to rescale around a potential
singularity and apply backward uniqueness arguments. The proof does not use profile decomposition.

1. Introduction

We are interested in blow-up criteria for solutions of the incompressible Navier—Stokes equations
diu—Au+u-Vu+Vp =0,
divu =0, (NSE)
u(-,0) =ug
in Q1 := R? x (0, T') with divergence-free initial data 1 € Cg° (R3). It has been known since [Leray
1934] that a unique smooth solution with sufficient decay at infinity exists locally in time. Furthermore,

Leray proved that there exists a constant ¢, > 0 with the property that if 7* < oo is the maximal time of
existence of a smooth solution, then

3
1 =5
O = 1

for all 3 < p < oco. Such a characterization exists because the Lebesgue norms in this range are subcritical
with respect to the natural scaling symmetry of the Navier—Stokes equations,

u(x,t) = ru(Ax,A%t),  p(x,t) = A2 p(hx, A%1). (1-2)

The behavior of the critical L3 norm near a potential blow-up was unknown until the work of Escauriaza,
Seregin, and Sverdk [Escauriaza et al. 2003], who discovered an endpoint local regularity criterion in
the spirit of the classical work [Serrin 1962]. In particular, they demonstrated that if  is a Leray—Hopf

MSC2010: 35Q30.
Keywords: Navier—Stokes equations, Besov spaces, blow-up criteria.

1415


http://msp.org/apde/
http://dx.doi.org/10.2140/apde.2018.11-6
http://dx.doi.org/10.2140/apde.2018.11.1415
http://msp.org

1416 DALLAS ALBRITTON

solution of the Navier—Stokes equations with maximal existence time 7* < oo, then
limsup [[u (-, 1)| L3 (R3) = oo (1-3)
AT

Their proof uses the e-regularity criterion of Caffarelli, Kohn, and Nirenberg [Caffarelli et al. 1982] in
an essential way, and moreover it introduced powerful backward uniqueness arguments for studying
potential singularities of solutions to the Navier—Stokes equations. The proof is by contradiction: If a
solution forms a singularity but remains in the critical space L° L3 (Q7+), then one may zoom in on the
singularity using the scaling symmetry and obtain a weak limit. The limit solution will form a singularity
but also vanish identically at the blow-up time. By backwards uniqueness, the limit solution # must be
identically zero in spacetime, which contradicts that it forms a singularity. This method was adapted by
Phuc [2015] to cover blow-up criteria in Lorentz spaces. Interestingly, backwards uniqueness techniques
have also been employed in the context of harmonic map heat flow by Wang [2008]. For a different proof
of the criterion, see [Dong and Du 2009].

A few years ago, Seregin [2012a] improved the blow-up criterion of Escauriaza, Seregin and Sverdk
by demonstrating that the L3 norm must become infinite at a potential blow-up:

I )| 3@y = oo. 1-4
tTHTn*HU( M3 @sy =00 (1-4)

The main new difficulty in the proof is that one no longer controls the L% L3 norm when zooming in
on a potential singularity. Seregin addressed this difficulty by relying on certain properties of the local
energy solutions introduced by Lemarié-Rieusset [2002]; see also [Kikuchi and Seregin 2007]. However,
an analogous theory of local energy solutions was not known in the half-space Ri ={xeR3:x;3>0.!
In order to overcome this obstacle, Barker and Seregin [2017] introduced new a priori estimates which
depend only on the norm of the initial data in the Lorentz spaces L34, 3 < ¢ < oc. This is accomplished

by splitting the solution as
tA

u=e"ug+w, (1-5)
where w is a correction in the energy space. The new estimates allowed Barker and Seregin to obtain
an analogous blow-up criterion for Lorentz norms in the half-space. Later, Seregin and Sverak [2017]
abstracted this splitting argument into the notion of a global weak L3 solution. We direct the reader to
[Barker et al. 2013] for global weak solutions with initial data in L3

Recently, there has been interest in adapting the “concentration compactness + rigidity” road map of
[Kenig and Merle 2006] to blow-up criteria for the Navier—Stokes equations. This line of thought was
initiated by Kenig and G. Koch [2011] and advanced to its current state by Gallagher, Koch, and Planchon
in [Gallagher et al. 2013; 2016]. Gallagher et al. succeeded in extending a version of the blow-up criterion

to the negative regularity critical Besov spaces Bls,” q (R3), 3 < p,q < oo. Here, spi=—1+ % is the
critical exponent. Specifically, it is proved in [Gallagher et al. 2016] that if 7* < oo, then
h:r;;}ip € Ol o 3y = 00 (1-6)

11t appears that this theory has recently been developed in [Maekawa et al. 2017].
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This proof is also by contradiction. If there is a blow-up solution in the space L?O(B;‘fq) x, then one may
prove via profile decomposition that there is a blow-up solution in the same space and with minimal
norm, made possible by small-data-global-existence results [Kato 1984]. This solution is known as a
critical element. By essence of its minimality, the critical element vanishes identically at the blow-up
time, so one may apply the backward uniqueness arguments of Escauriaza, Seregin, and Sverdk to obtain
a contradiction. The main difficulty lies in proving the existence of a profile decomposition in Besov
spaces, which requires some techniques from the theory of wavelets [Koch 2010; Bahouri et al. 2011b].
A secondary difficulty is obtaining the necessary estimates near the blow-up time in order to apply the
e-regularity criterion. We note that [Kenig and Koch 2011] appears to be the first application of Kenig
and Merle’s road map to a parabolic equation. The nonlinear profile decomposition for the Navier—Stokes
equations was first proved in [Gallagher 2001]. The paper [Bahouri et al. 2014] contains further interesting
applications of profile decomposition techniques to the Navier—Stokes equations.

In this paper, we obtain the following improved blow-up criterion for the Navier—Stokes equations in
critical spaces:

Theorem 1.1 (blow-up criterion). Let 3 < p,q < oo and ug € BIS,’,’ q (R3) be a divergence-free vector field.
Suppose u is the mild solution of the Navier—Stokes equations on R* x [0, T*) with initial data uy and
maximal time of existence T*(ug). If T* < 0o, then

tlTiIYI}*”“('J)||B;{’q(R3) = 0. (1-7)

The local well-posedness of mild solutions, including characterizations of the maximal time of existence,
are reviewed in Theorem A.2.

Let us discuss the novelty of Theorem 1.1. First, this theorem extends Seregin’s L3 criterion (1-4) to the
scale of Besov spaces and replaces the lim sup condition in Gallagher, Koch and Planchon’s criterion (1-6).
Our proof does not rely on the profile decomposition techniques in [Gallagher et al. 2016] and may be
considered to be more elementary. Rather, our methods are based on the rescaling procedure in [Seregin
2012a]. Regarding optimality, it is not clear whether Theorem 1.1 is valid for the endpoint spaces BIS,’,’ 00
and BMO™!, which contain nontrivial —1-homogeneous functions, e.g., |x|~!. Indeed, if the blow-up
profile u(-, T*) is locally a scale-invariant function, then rescaling around the singularity no longer
provides useful information.? It is likely that this is an essential issue and not merely an artifact of the
techniques used here. For instance, one may speculate that if type-I blow-up occurs (in the sense that the
solution blows up in L™ at the self-similar rate), then the VMO™! norm does not blow-up at the first
singular time.

As in previous works on blow-up criteria for the Navier—Stokes equations, the main difficulty we
encounter is in obtaining a priori estimates for solutions up to the potential blow-up time. We also
require that the estimates depend only on the norm of the initial data in B;,‘:’q. The low regularity of
this space creates a new difficulty because the splitting (1-5) does not appear to work in the space Bls,’fq

2Since the submission of this paper, T. Barker has proven the blow-up criterion lim mrlluC, Dl 50 = 00 using Calder6n-

type solutions, under the extra assumption that u( -, 7*) vanishes in the rescaling limit [Barker 2017] See also the forthcoming
work [Albritton and Barker 2018] of T. Barker and the author.
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when % + % < 1. One problem is that when obtaining energy estimates for the correction w in (1-5), the
operator

T
(U, ug) l—)/(; /R3 ¢"Puy-VU - U dx dt (1-8)

is not known to be bounded for U € L?"Li N LfH; and ug € B;,‘:’q. This is because e’Auo “just misses”
the critical Lebesgue space L} LY with % + % = 1. Therefore, to obtain the necessary a priori estimates,
we rely on a method essentially established by C. P. Calder6n [1990]. The idea is as follows. We split the
critical initial data u¢ € B;,’: p into supercritical and subcritical parts:

uo=Ug+ Vo € L + BJ2'®. (1-9)

When small, the data V} in a subcritical Besov space gives rise to a mild solution V' on a prescribed time
interval (not necessarily a global mild solution). The supercritical data Uy € L? serves as initial data for a
correction U in the energy space. We will refer to solutions which split in this way as Calderdn solutions,
see Definition 2.1, and we construct them in the sequel. Note that the unboundedness of (1-8) is similarly
problematic when proving weak-strong uniqueness in Besov spaces. In recent work on weak-strong
uniqueness, Barker [2018] has also dealt with this issue via the splitting (1-9). We remark that Calderén’s
original idea was to construct global weak solutions by splitting L? initial data for 2 < p < 3 into small
data in L3 and a correction in L2 This idea has also been used to prove the stability of global mild
solutions [Gallagher et al. 2002; Auscher et al. 2004].

Let us briefly contrast the solutions we construct via (1-9) to the global weak L? solutions introduced
in [Seregin and Sverak 2017], which are constructed via the splitting (1-5). The correction term w in (1-5)
has zero initial data, which allows one to prove that an appropriate limit of solutions also satisfies the
energy inequality up to the initial time. For this reason, the global weak L3 solutions are continuous with
respect to weak convergence of initial data in L. Since the splitting (1-9) requires the correction to have
nonzero initial condition Uy, an analogous continuity result is not as obvious for Calderdn solutions. We
do not seek to prove such a result here as to avoid burdening the paper technically, but we expect that it
may be shown by adapting various ideas in [Seregin 2012b; Barker 2018]. Using similar ideas, we expect
that one could prove that all Calderén solutions agree with the mild solution on a short time interval.

Here is the layout of the paper:

e In Section 2, we prove the existence of Calderén solutions that agree with the mild solution until the
blow-up time. This is the content of Theorems 2.5 and 2.6. We also describe the properties of weak
limits of Calderén solutions in Theorem 2.7. The splitting arguments for initial data in Besov spaces are
contained in Lemma 2.2.

e In Section 3, we prove Theorem 1.1 using the results of Section 2.

e We conclude with an extensive Appendix that summarizes the local well-posedness theory of mild
solutions in homogeneous Besov spaces and collects well-known theorems about e-regularity and backward
uniqueness. We include it for the reader’s convenience and to make the paper self-contained.
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Notation is reviewed in the Appendix. One important point is that we do not distinguish the notation of
scalar-valued and vector-valued functions.

After completion of the present work, we learned that T. Barker and G. Koch (personal communication,
2017) obtained a different proof of the blow-up criterion (1-7). Their proof treats mild solutions by
exploiting certain properties of the local energy solutions of Lemarié-Rieusset.

2. Calderén’s method

In this section, we present properties of the following notion of solution:

Definition 2.1 (Calderdn solution). Let 3 < p < o0 and ug € Bls,‘: p (R?) be a divergence-free vector field.
Suppose T > 0 is finite. We say that a distribution # on Qr is a Calderon solution on Q7 with initial
data u if the following requirements are met:

u0=U0+V0, u=U—|—V, (2—1)
where
Upe LARY). Voe By (R, (2-2)
UeLPL2NL2HNQr), Veky ™ (Qr), (2-3)
q>p, 0<e<-—sg, (2-4)

and V is the mild solution of the Navier—Stokes equations on Q7 with initial data Vj; see Theorem A.7.
In addition, U satisfies the perturbed Navier—Stokes system

0 U—-AU +divU QU +divUQ®V +divi U =—-VP, divU =0 (2-5)
in the sense of distributions on O, where
3
PeLiLi(Qr)+L*(Q7). (2-6)

We require that U( -, 7) is weakly continuous as an L?(R?)-valued function on [0, T'] and that U attains
its initial condition strongly in L?(R?):

yﬁ}”U('at)_UOHLZ(RQ =0. (2-7)

Define
0:=(-A)"ldivdivV®V, p:=P+0Q. (2-8)

We require that (u, p) is suitable for the Navier—Stokes equations,
drlul? +2|Vul* < AJul? = div((ul® +2p)u), (2-9)
and that (U, P) is suitable for (2-5),

3 |U|1>+2|VU]? < A|U> —div((JU|* +2P)U) —div(JU |*V) —2U div(V @ U). (2-10)
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The inequalities (2-9) and (2-10) are interpreted in the sense of distributions evaluated on nonnegative
test functions 0 < ¢ € C§°(Qr). Lastly, we require that U satisfies the global energy inequality

151 151
/ |U(x,t1)|2dx+2/ / IVU(x,1)|? dx dt 5[ |U(x,to)|2dx+2/ / VU :VU dxdt,
R3 to JR3 R3 to JR3
@2-11)
for almost every 0 <ty < T, including ¢y = 0, and for all #; € (to, T'].

Splitting arguments. The next lemma allows us to represent critical initial data as the sum of subcritical
and supercritical initial data while preserving the divergence free condition. See Proposition 2.8 in [Barker
2018] for a detailed proof.

Lemma 2.2 (splitting of critical data). Let3 < p < q < oo and 6 € (0, 1) satisfy

l — Q + ﬂ (2-12)
r 2 q
Define s := sp/(1 — 0). For all A > 0 and divergence-free vector fields u € B;’,’p(R3), there exist
divergence-free vector fields U, V such thatu =U + V,

1-2

b
< kR 2 2-1
0l < cllul S 275, @13
p _»
IV 155y = Ml sy 215 2-14)

where ¢ > 0 is an absolute constant.

The proof is by decomposing the Littlewood—Paley projections as

Aju= (Aju)1{|Aju|>kj} + (Aju)l{lAjuls)»j}’ jez, (2-15)

with an appropriate choice of A; > 0, j € Z. The divergence-free condition is kept by applying the
Leray projector to the resulting vector fields. Recall that the Leray projector is a Fourier multiplier with
matrix-valued symbol homogeneous of degree zero and smooth away from the origin:

8.
L. 1<i,j<3. (2-16)

(P)ij :=8ij + RiRj, R;:= Ik <

Note that B;,q (R3) is indeed a subcritical space of initial data, since

3 0

We will often define & := 5 —s4 > 0.

Existence of energy solutions to NSE with lower-order terms. In this section, we will prove the existence
of weak solutions to the Navier—Stokes equations with coefficients in critical Lebesgue spaces. The
method of proof is well known and goes back to [Leray 1934].
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Proposition 2.3 (existence of energy solutions). Let Uy € L?(R?) be a divergence-free vector field,

and let

a,be L' L (0r), %+§=1, 3<r < oo, (2-18)

be vector fields for a given T > 0. Further assume that div b = 0. Then there exist a vector field U and
pressure P,

. 3
UeLPLNL{H(Qr), PeL;Li(Qr)+L*(Qr), (2-19)
such that the perturbed Navier—Stokes system
0, U—-AU +divUQU +divU @ b+divaU =—-VP, divU =0 (2-20)

is satisfied on Q in the sense of distributions. In addition, U( - ,t) is weakly continuous as an L*(R?)-
valued function on [0, T], and

1ti£||U(- )= Upll2@3) = 0. (2-21)
Finally, (U, P) is suitable for (2-20),
| UI>+2|VU|? < A|U|> =div((JU|* +2P)U) —div(|JU |*b) —2U div(a @ U) (2-22)

as distributions evaluated on nonnegative test functions 0 < ¢ € Cg°(Qr), and U satisfies the global
energy inequality

123 I
/ |U(x,t2)|2dxdt+2/ / |VU(x,t)|2dxdt§/ |U(x,t1)|2dx+2/ / a®U :VU dx dt
R3 t; JR3 R3 t; JR3

(2-23)
for almost every t; €0, T), including t; = 0, and for all t, € (t1, T).
In the statement above, U div(a ® U) is the distribution
T
(Udiv(a®U),<p):=—// a®@U:(U®Ve+¢VU)dxdt (2-24)
0 JR3

for all p € C§°(Q7).
Let us introduce some notation and basic estimates surrounding the energy space. For 0 <ty < T < oo,
we define Q.7 1= R3 x (1o, T). If U € LL2 N L2H!(Q;,.1), we define the energy norm

T
|U|§Qt0T:= sup / |U(x,t)|2dx+2/f IVU(x,t")|? dx dt’. (2-25)
<00 R3 to JR3

to<t<T

For simplicity, take 7o = 0. By interpolation between L L2(Q7) and L?LS(Q7), one obtains

IUNLm ez = <lUl2,0r- (2-26)
24323 2<m<oo. 22n<e. (2-27)
m n 2
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For instance, it is common to take m = n = %. Hence, if a € LiL;(QT) is a vector field as in
Proposition 2.3, we have

T
/ |U|? |a|? dx dt < c|al| (2-28)
0

2 2

Lizion!Uor
g 2 : 2

| WwRlalaxdi = aly o U o, (2-29)

Let us now recall the tools used to estimate the time derivative d,U of a solution U that belongs to the
energy space. To start, we will need to estimate the pointwise product of u € L?(R?) and v € H!(R?):

||”U||H—1/2(R3) = C||”||L2(R3)||U||31(R3)§ (2-30)
see Corollary 2.55 in [Bahouri et al. 2011a]. For instance, it follows that
. 2
||d1VU®U||L%Hx—3/2(QT) SC|U|2,QT' (2-31)

.3
The time derivative d,U is typically only in L2 H, 2(Qr) unless the nonlinear term is mollified. Notice
also that H_%(R3) s H™3 (R3). Suppose (U™),en is a sequence of vector fields on Q7 such that

o U ®Nz.07 + 100Ul o220 < -32)
n

According to the Aubin—Lions lemma, see Chapter 5, Proposition 1.1 in [Seregin 2015], there exists a
subsequence, still denoted by U ) such that

U™ U in LAB(R)x(0,T)), R>0. (2-33)

Since sup,,cp || U ™ I L10/3(0,) < 0o, the subsequence actually converges strongly in L3(B(R) x (0, T)).
We will use this fact frequently in the sequel.

For the remainder of the paper, let us fix a nonnegative radially symmetric test function 0 < 6 € C° (R3)
with [p3 6 dx = 1. For a locally integrable function f € L}

10C([RZ’) we make the following definition:

0y = —9(;) (fp:=f=x0, p>0. (2-34)
The proof of the next lemma is well known, and we include it for completeness.

Lemma 2.4 (solution to mollified Navier—Stokes equation with lower-order terms). Let p > 0. Assume
the hypotheses of Proposition 2.3. Then there exists a unique U in the class

UeC(0.T]: L2 (R*) NL7Hy(Qr), U € L{H, ' (Qr). (2-35)
satisfying the mollified perturbed Navier—Stokes system in L%Hx_ Lor)
0 U—-AU +PdiviU @ (U),) +Pdiv(U ® b+a®U) =0, divU =0, (2-36)

and such that U(-,0) = Uy in L*(R?).
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Proof. Assume the hypotheses of the lemma and define T} := T in the statement, in order to reuse the
variable 7. We will consider the bilinear operator

t
By(v,w)(-,1) :=/ e(’_S)A[P’divv@)(w)p ds, (2-37)
0
defined formally for all vector fields v, w on spacetime, as well as the linear operator
t
L(w)(-,1):= [ eIAP div(a @ w 4+ w ® b) ds. (2-38)
0

For instance, by classical energy estimates for the Stokes equations, the operators are well defined
whenever v ® (w),, a ® w, w ® b are square integrable. Specifically, due to (2-28) and the energy
estimates, we have that B and L are bounded operators on the energy space, and

B, w3 o, <clv®@W)yliag,, < cOTWE g Wl o, (2-39)
|L(w)|§:QT =< C”Cl X w”iz(QT) . ||a||iéL§c(QT)|w|§’QT (2'40)

for all 7' > 0. Notice that b does not enter the estimate, since divb = 0. In addition, the operators take
values in C ([0, T']; L?(R?). Moreover, notice that ||a||L§LQ(QT) < 1 when 0 < T « 1. Hence, one may
apply Lemma A.3 to solve the integral equation

U(-,t) = e"2Uy — B,(U, U)(-,1) — L(U)(-,1) (2-41)

up to time 0 < 7" < 1. The integral equation (2-41) is equivalent to the differential equation (2-36). The
solution may be continued in the energy space up to the time 7y by the same method as long as the energy
norm remains bounded. This will be the case, since a solution U on Q7 obeys the energy equality

123 I
/|U(x,t2)|2dx+2// |VU|2dxdt=/ |U(x,tl)|2dx+2// a®U :VU dx dt
R3 t1 JR3 R3 t JR3

2 2
= [ WP v+ AUk, 42

forall 0 <t <t < T, where A(t1,t,) := c||a||L£L§(Qt L) Then one simply takes ¢, close enough to #;
1-f2

such that A(z1,1,) < % to obtain a local-in-time a priori energy bound. By repeating the argument a finite

number of times, one obtains

Ul2.0r = CUIVoll2@s)- 4l s 1 07,)- (2-43)
Hence, the solution may be continued to the time 7. Finally, uniqueness follows from the construction. [J

Proof of Proposition 2.3. We follow the standard procedure initiated by Leray [1934] of solving the
mollified problem and taking the limit as p | 0. The arguments we present here are essentially adapted
from [Seregin and Sverik 2017; Seregin 2015, Chapter 5], so we will merely summarize them.
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(1) Limits. For each p > 0, we denote by U” the unique solution from Lemma 2.4. From the proof of
Lemma 2.4, recall the energy equality

12 %)
/lUp(x,t2)|2dx—|—2// |VU"|2dxdt=/ |Up(x,ll)|2dx+2/f a®UP:VUP dx dt
R3 t JR3 R3 t1 JR3

(2-44)
forall 0 <t; <t =T, as well as the a priori energy bound
1U”12,07 = CUIUoll L2 @3 ”a”LﬁLS}(QT))‘ (2-45)
_3
In order to estimate the time derivative d; U € LfH + 2 (O7), we rewrite (2-36) as
;U =AU —Pdiv(U” ® (U?),) —Pdiv(a U + UP ® b). (2-46)

Then, due to the estimate (2-28), one obtains
[AU =Pdive®@ U+ U ® b)”L%H;l(QT) = C([1Usll L2 w3 ”a“L{,‘L;(QT)’ Hb”LﬁL;(QT))v (2-47)
and in light of (2-30), we also have
P diV(Up ® (Up)p)”L%HX—WZ(QT) = C”(Up ® (Up)p)”L%HX—I/Z(QT)
= C(1Uoll2@3)- ”a“LiLSc(QT))' (2-48)
The resulting estimate on the time derivative is
19:U°1 2 =572,y < CUUll L2y Il 1y 182 100 (2-49)

By the Banach-Alaoglu theorem and (2-45), there exist U € L° L2 N L? H; (Qr) and a sequence py | 0
such that
UPk: U in L®L2(Q7), VUPk ~ VU in L*(O7). (2-50)

In addition, by (2-49) and the discussion preceding Lemma 2.4, a subsequence may be chosen such that
UP U in L} (Lip)x(Q1). (2-51)

Moreover, the estimate (2-49) allows us to prove that
/ UPk(x,-) - o(x) dx—>/ U(x, ) -o(x)dx in C([0,T)) (2-52)
R3 R3

for all vector fields ¢ € L?(R?). In particular,
UPk(-,t) =~ U(-,t) in L*R%), t€l0,T], (2-53)

and the limit U( -, ¢) is weakly continuous as an L?(R3)-valued function on [0, T']. Here is our argument
for (2-52), based on Chapter 5, p. 102 of [Seregin 2015]. For each vector field ¢ € C° (R3), consider the
family

Fop = {/R3 Up(x,-)-w(x)dx:,o>0}CC([O,T]). (2-54)
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The family F, is uniformly bounded, since

‘/ UP(x,t)-¢(x)dx

=|U® ||L?OL,%‘(QT) lell2@s)
= CUIUol 23y lall g pr (o p) 19N L2(R3) (2-55)

forall 0 <t < T. It is also equicontinuous:

‘ f UP(x.12) - 9(x) — UP(x.11) - 9(x) dx

1
<l|—1]? ||atUp||L%H;3/2(QT)||‘/)||H3/2(R3)
1
= |2 =tul2C(UollL2wsy: lallpt r.opy 101z r o) Il@l H32@m3)  (2-56)

for all 0 <#;,7, < T. Hence, we may extract a further subsequence, still denoted by pg, such that (2-52).
By a diagonalization argument and the density of test functions in L?(R3), we can obtain (2-52) for all
vector fields ¢ € L?(R?). This completes the summary of the convergence properties of UPk as py |, 0.

Let us now analyze the behavior of U near the initial time. In the limit pg | 0, the energy equality
(2-44) gives rise to an energy inequality:

t
/ |U(x,t)|2dx+2[/ |VU|? dx dt’
R3 0 Jr?
2
E/R3 [Uo(0)[” dx + C(|[Uoll L2wsy- lall gt r o pplallpr o,y (2-57)

for almost every ¢ € (0, T'). This is due to the lower semicontinuity of the energy norm with respect to
weak-star convergence. Since U(-,t) is weakly continuous as an L?(R*)-valued function, the energy
inequality may be extended to all € (0, T']. Finally, since U(-, 0) = Ug and limsup, o [|U (-, )| L2 (g3) <
| Uoll £2(r3) (by taking 7 | 0 in (2-57)), we obtain

lim||U(-, 1) — Ul 2r3) = 0. (2-58)
140
We have proven the desired properties of U except for suitability and the global energy inequality.

Let us now take the limit of the pressures. The pressure P? associated to U” in (2-36) may be
calculated as PP := Py + P},

Pf = (=A)" " divdiv(U? ® UP)p). (2-59)
Pl = (—A)"'divdiviU’ ® b +a®@ U"). (2-60)
By the Calderén—Zygmund estimates, we have the following bounds independent of the parameter p > 0:
o
” Pl ”L%L,%'/Z(QT) =< C” U’ ® (Up)P ”L%Li/Z(QT)

=clUPN ez U L2801
= C(||U0||L2(R3)v ”a”LiLQ(QT))’ (2-61)
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and similarly,
”Pé)”Lz(QT) = c||a® Up+ Up®b||L2(QT)

= C|Up|2,QT(||a||L;L;(QT) + ”b”LiL,Q(QT))

= C(||U0||L2(R3), ”a”LiLQ(QT)’ “b”LiLQ(QT))' (2-62)
In particular, we may pass to a further subsequence, still denoted by pg, such that
3
P ~ Py inL7LI(Qr). PY*— P, inL*(Qr), (2-63)
3
PPk~ P:=P;+ P, inL}(L2)x(O7). (2-64)

Recall that UPk — U in L;” (L3 ). Utilizing this fact in (2-59) and (2-60), we observe that

loc
—AP; =divdivU U, —AP,=divdive®U +U ®b) (2-65)

in the sense of distributions on Q7. Finally, the Liouville theorem for entire harmonic functions in
Lebesgue spaces implies

Pi=(AN)"divdivU U, P, =(—A)"'divdivle® U + U ®b). (2-66)
Due to the limit behavior discussed above, it is clear that (U, P) solves the system (2-20) in the sense of
distributions.

(2) Suitability. We will now prove that U is suitable for (2-20). Specifically, we will verify the local
energy inequality (2-22) following arguments in [Lemarié-Rieusset 2002] (see p. 318). We start from the
mollified local energy equality

3 |UP>+2|VUP)? = A|UP > —div(JUP|*(UP),+2 PPUP) —div(|U”|*b) —2U" div(a®@ U"), (2-67)

which is satisfied in the sense of distributions by solutions of (2-36) on Q7. Let us analyze the convergence
of each term in (2-67) as p; | 0. Recall that

3

PP~ P in L2 (O7), UPk - U in L} (Q7). (2-68)
This readily implies
|UPK|>(UPK),, — |UIPU  in L (Q7), PPEUPE — PU in L} (Q7), (2-69)
3
|UPk|> - |U|* in L2.(Q71). (2-70)

Moreover, according to the estimates (2-28) and (2-29),

|UPk|?b — |U|*b in L'(O7), (2-71)
UPk div(a @ UP<) - U div(a® U) in S'(Or). (2-72)

It remains to analyze the term |VU Pk |? |2

. Upon passing to a subsequence, |VU Pk |~ converges weakly-star

in M(Qr), the space consisting of finite Radon measures on Q, but its limit may not be [VU|?. On
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the other hand, recall that VUP* — VU in L?(Q7). Hence, by lower semicontinuity of the L? norm
with respect to weak convergence,

liminf/ |IVUPK|> —|VU|*dx >0 (2-73)
okd0 JE
for all Borel measurable sets £ contained in Q7. Therefore, upon passing to a further subsequence,
W= 111? |IVUPK|> —|VU |? (2-74)
Pr

is a nonnegative finite measure on Q 7, and (2-67) becomes
| U1>+2|VU? = AU —div(((U|> + 2P)U) —div(JU |*b) —2U div(@ @ U) — 2. (2-75)

(3) Global energy inequality. Finally, let us pass from the local energy inequality (2-22) to the global
energy inequality (2-23) in the following standard way; see [Lemarié Rieusset 2002, p 319].

Let 0 <7 € C5°(R) be an even function such that n = 1 for [z < 4, n=0for |t| > 2, and [ ndt =1.
Define n¢(¢) := 8_1 n(e~1). Given 0 < ty < t; < T, consider

t
Ve(t) = / Ne(t' —to) —ne(t' —t1)dt’, teR. (2-76)

—00
The functions ¥, are smooth approximations of the characteristic function 1, ;,). Now let 0 < ¢ €
C(;’o(IR3) such that ¢ = 1 on B(1) and ¢ = 0 outside B(2). Define

Oy p(x.1) 1= ws(z)w(%)z, (x,1) € R3+!, (2-77)

Using @, g in the local energy inequality (2-22) with 0 < & < 1, we have

- [ L) +2 [ v (R)UP
s/wgw vk +% [ veo(%) o) o

5 [ e ()0 (%) U+ % /w Vo)) 1w

+E/we<p R a®U U®(v¢) +2/ws<p a®U VU, (2-78)

where all the integrals are taken over Q7. Since U is in the energy space and P € L%Lz (O1)+L*(07),
we may take the limit as R 1 oo to obtain

d
—/ dl“‘"|U|2+2/ %IVU|2§2/ Yea®U : VU. (2-79)

Moreover, if 79, 71 are Lebesgue points of |U(-, )| 12(g3), then in the limit as ¢ | 0,

5]
/|U(t1)|2+2// |VU|2§/ |U(to)|> + 2 /a®U:VU. (2-80)
R3 to JR3 1o JR3
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The case when the initial time is zero is recovered from (2-80) by taking the limit as #y | 0, since
lim; o |U(-,#) — Uo |l .23y = 0 was already demonstrated in (2-58). |
Existence of Calderén solutions. We are now ready to prove the existence of Calderdén solutions.

Theorem 2.5 (existence of Calderén solutions). Let T > 0 and 3 < p < 0o. Suppose ug € B;,‘: » R¥) isa

divergence-free vector field. Then there exists a Calderon solution u on QT with initial data uy.

Proof. (1) Splitting arguments. Assume the hypotheses of the theorem, and let g € (p, 00). According to
Lemma 2.2, there exists 0 < & < —s4 such that for all M > 0, we may decompose the initial data as

Uuo =U0+V0, (2—81)
where
Up € L*(R%).  |[UsllL2@ms) < Cllluoll gsv 3y M) (2-82)
5Sq € /3
Vo € Bq,q (R%), ”VO”B;?;_S(R-?) <M. (2-83)

The decomposition depends on M > 0. By Theorem A.7, there exists a constant y := y(g,&,T) > 0
such that whenever

Vo ”BZ‘I;‘E(R.’;) =V, (2-84)

there exists a unique mild solution V' € IC;" +8(QT) of the Navier—Stokes equations on Q7 with initial

data V}, and the mild solution obeys
S & < S & . =
IV llsate gy < €@ Vol gove oy (2:85)
Let M = y when forming the decomposition (2-81). The corresponding mild solution V' with initial
data V} exists on Q7 and satisfies (2-85). Hence,
2 3
VeLlLi(Qr), 7= 1. (2-86)
LetU € LL2 N L2H}(Q7) be a solution constructed in Proposition 2.3 to the perturbed Navier—Stokes
equation (2-20) with initial data Uy € L?(R?) and coefficients a = b = V. If u = U + V satisfies the
local energy inequality (2-9), then u is a Calderén solution on Q7 with initial data u.
(2) Suitability of full solution. Let us return to the approximation procedure for U in Proposition 2.3.
Define
uP:=UP+V, pP:=P,+0Q, Q:=(-A)"ldivdivV@V. (2-87)

We will prove that the solution u = U + V' with pressure p = P + Q satisfies
Aelul® +2|Vul? = Alul? —div((u|® + 2p)u) — 2u (2-88)

in the sense of distributions on Q7, where u is a finite nonnegative measure on Q7. Let us start from
the mollified local energy equality for u?,
3¢ uP)? 4+ 2|VuP > = Aluf|* —div(ju®|*(uP), + 2 pPuP)

—uP div” @ (V= (V)p) + V& UP—(UP)))). (2-89)
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This is the same equality as if u” solved the mollified Navier—Stokes equations, see, e.g., [Lemarié-
Rieusset 2002, p. 318], except for the second line, which adjusts for the fact that V' solves the actual
Navier—Stokes equations instead of the mollified equations. The distribution on the second line converges
to zero as pg | 0, and all the other convergence arguments are as in Step 2 of Proposition 2.3. O

We now demonstrate that there exists a Calderén solution which agrees with the mild solution until its
maximal time of existence.

Theorem 2.6 (mild Calderén solutions). Under the assumptions of Theorem 2.5, there exists a Calderon
solution u on Qp with initial data ug such that u agrees with the mild solution NS(ug) until the time
min(7, T*(ug)).

The mild solution NS(u¢) under consideration is constructed in Theorem A.2.

Proof. (1) Introducing the integral equation. Let Uy, V), V be as in Step 1 of Theorem 2.5. From now
on, we will define 7y := T in the statement of the theorem, so that the variable 7" can be reused.
The set-up is as follows. Recall that for all 0 < 7" < min(Ty, T'*),

NS(uo) € Kp(Q1) N Koo(Q7), (2-90)
V ey (or)nkL e (0r). (2-91)

Let us define U := NS(ug) — V. Then U € K (Q7) N Koo(Q7) for all 0 < T < min(Ty, T*) is a mild
solution of the integral equation

W(-.t)=e"2Uy— BW,W)(-,t)— L(W)(-,1), (2-92)

where we formally define
B, w)(+,1):= /le(’_s)A[P’divv@wds, (2-93)
L(w)(-,1):= Bo(w, V)(-,0)+ B(V, w)(-,1) (2-94)

for all vector fields v, w on spacetime. The initial data Uy belongs to the class
Up € [By,(R®) + By *(R*)] N L2(RY). (2-95)

First, we will demonstrate that the mild solution of the integral equation (2-92) in ICoq(QT) is unique,
where 0 < T < min(Ty, T*). Notice that in the decomposition u = U + V' of a Calderén solution, the
vector field U formally solves (2-92). We will show that in the proof of Theorem 2.5, it is possible
to construct U in the space I%q(QT). Therefore, U will satisfy U = U on QOr, and the proof will be
complete.

(2) Existence of mild solutions to integral equation. Let us summarize the local well-posedness of mild
solutions W € IGC(QT) to the integral equation (2-92). Our main goal is to establish estimates on the
operators B and L. Then the local existence of mild solutions in IOCq(QS) for some 0 < § <« 1 will
follow from Lemma A.3.
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Let0 <7 <min(7y, T*) and v, w € IGC(QT). First, observe that L : I%q(QT) — IOCq(QT) is bounded

with operator norm satisfying || L|| R0 < 1 when 0 < 7' « 1. Indeed, according to the Kato estimates
q

in Lemma A.1,
LWk, 0r) = 1B, V) + BV, V), 0r) =cT2lvlk,or) IIVII,C;qw(QT)- (2-96)

That L preserves the decay properties near the initial time follows from examining the limit 7" |, 0 in the
estimates above. One may also show that B is bounded on Ky (Q 1) with norm independent of 7. Finally,
due to (2-95), we have the property

lim ||’ AU, =0. 2-97
Ylwlle oll, 0 (2-97)

Hence, Lemma A.3 implies the existence of a mild solution W € Xg to the integral equation (2-92)
for a time 0 < S < 1. The solution W(-, ) is also continuous in L4(R3) after the initial time. As for
uniqueness, note that each mild solution W € IGC (Qr) of (2-92) obeys the property that W +V € I%q( or)
is a mild solution of the Navier—Stokes equations, so W 4+ V = NS(ug) and W = U on or.

B)Uisin I%q(Q s) for 0 < S < 1. Let us return to the approximations U# constructed in the proofs of
Theorem 2.5 and Proposition 2.3. Recall that U” solves the system

0:UP —AUP +divUP @ (UP), +divUP @V +divV  UP = -V PP,
divU? =0, (2-98)

with initial condition U”(-,0) = Uy. By repeating the arguments in Step 2, there exists a time S > 0
independent of the parameter p > 0 and a unique mild solution W* € K;(Q ) of the integral equation

WP(-, 1) =e"2Uy— Bpy(W, W)(-,1) — L(W)(-,1), (2-99)

where the operator B, is defined by
t
B,(v, w)(t) := / =8P divy ® (w), ds. (2-100)
0

Since Uy € L*(R?), we may shorten the time S > 0 so that W* € L L2(Q). This assertion follows
from applying Lemma A.3 in the intersection space Kz(Qs) N L L2(Qy) with 0 < S < 1, once we
have the necessary estimates

||L(U)||L;>OL§((QT) = CTEHUHL([)OL%((QT)”V||K;q+S(QT)’ (2-101)
[ Bo(v, w)”L?OL)Z((QT) = C”v”L?OL;(QT) ”w”ICq(QT)~ (2-102)

In fact, we obtain that W* € C([0, S]; L>(R3)N L%H; (Qs). This follows from viewing W as a solution
of the mollified Navier—Stokes equations (no lower-order terms) with initial data Uy € L?(R?) and forcing
term div F, where

F=-WPQV-VQWPeL*Qs). (2-103)

since V € K3JT¢(Qs) and WP € L¥L2(Qs).
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Finally, we pass to the limit as p | 0. The only possible issue is that I%q(Q s) is not closed under
weak-star limits, but this will not be a problem because Lemma A.3 actually gave the uniform bound

1UP N, c0r) <Kk(T), 0<T <Ty, (2-104)

where «(T') is a nonnegative continuous function on the interval [0, S] and «(0) = 0. Now by taking the
weak-star limit along a subsequence pf | 0, we obtain

1Ullkc,0r) =4(T), 0<T <S. (2-105)

Together with the convergence arguments in Proposition 2.3, this implies that U € IOCq(Q s) is a mild
solution of the integral equation (2-92). By the uniqueness argument in Step 2, U = U on Qg.

(4) Agreement until T*(ug). So far, we have only shown that U = U on a short time interval [0, S]. After
the initial time, the mild solutions NS(u() and V' of the Navier—Stokes equations are in subcritical spaces:

NS(uo), V € C([to, min(Ty, T*)); L1(R?)) (2-106)

for all 0 < 7o < min(Ty, T*). We will prove that U is in the energy space and then argue via weak-strong
uniqueness. To do so, one may develop the existence theory for mild solutions W € C([to, T]; L4(R3))
of the integral equation

t t
W(,t)=etAT( 1) — | "™D2PdivW @ W ds —/ AP LIVIW QV +V @ W) ds,
11

to 0
(2-107)
where o € [Ty, min(Ty, T*)). Note that whenever U (-, 1) € L?*(R?), the unique mild solution W will
also be in the energy space. The proof is similar to Steps 2-3. In this way, one obtains that

UeC(0.7T): L*(R*) N L7 HY(Qr) (2-108)

for all 0 < T' < min(7y, T*) and satisfies the energy equality

_ 153 ~ - 15} ~ -
/|U(x,z2)|2dx+2f / |VU|2dxdt:/ |U(x,t1)|2dx+2/ / VU :VUdxdt (2-109)
R3 1 R3 R3 t R3

forall 0 <#; <t, <min(Ty, T*). In fact, by the Gronwall-type argument in Lemma 2.4, one may actually
show that U € L%H; (Qmin(Tn,T*))- In addition, we know that U obeys the global energy inequalitzl
(2-23) for almost every 0 <#; < Ty, including #; = 0, and for every #, € (¢1, Ty]. Let us write D :=U —U.
Then D obeys the energy inequality

123 123 -
/ |D(x,t2)|2dx+2/ / |VD|2dxdt§2/ (T +V)®D:VDdxdt, 2-110)
R3 15} R3 1 R3

where 1 := %To. To obtain the energy inequality for D, one must write | D|?> = |U|? + U1 -2U-U,
|VD|? = |VU|?> 4+ |VU|?> —2VU : VU, and utilize the identity

t
/U(x,t)-U(x,t)dx+2// VU:Vdedt/—/ U(x,0)-W(x,0)dx
R3 0 JRr3 R3

t
=/ @, U—AU)-U+U-(3,0—AT)dxdt’. (2-111)
0 JR3
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This argument is typical in weak-strong uniqueness proofs. The identity (2-111) is clear for smooth vector
fields with compact support, but it may be applied in more general situations by approximation. As in
Lemma 2.4, the energy inequality gives

2 2
1Dl3g, ., = Bt1.02)IDl3 o, (2-112)
where we have defined

B(ty, 1) == c(”U”thLgc(Qtl,tz) + ||V||L£L§(Qz1.t2))' (2-113)

One then takes 7, close to ¢; such that B(#1,1;) < % to obtain D = 0 on Qy, s,. The equality U = U may
be propagated forward until min(7}, 7*) by repeating the argument (even if ||U || LILIQ, +) = 00). O
X 1.

Finally, here is a result that contains the limiting arguments we will use in Theorem 1.1. Namely,
we demonstrate that a weakly converging sequence of initial data has a corresponding subsequence of
Calder6n solutions that converges locally strongly to a solution of the Navier—Stokes equations.

As a reminder, we do not prove that the limit solution is a Calderén solution, though we expect such
a result to be true. The issue is that the limit solution does not evidently satisfy the energy inequality
starting from the initial time.

Theorem 2.7 (weak convergence of Calderdn solutions). Let 3 < p < oo and T > 0. Suppose (u(()")) neN
is a sequence of divergence-free vector fields such that

ul” ~ug in By p(R?). (2-114)
Then for each n € N, there exists a Calderon solution u® on Q with initial data u(()") and associated pres-

sure p(”) such that the solution u™ agrees with the mild solution NS (ug")) until time min(T, T*(ug"))).
Furthermore, there exists a distributional solution (u, p) of the Navier—Stokes equations on Q1 with
the following properties:

uo=Ug+Vy, u=U+YV, (2-115)
where
Upe LXR®), Vye Bt *(RY), (2-116)
UeL®L NL AN Qr), Vekyt(0r). @2-117)
q>p. 0<e<-—s, (2-118)

V' is a mild solution of the Navier—Stokes equations on Q1 with initial data Vy, and U solves the perturbed
Navier—Stokes system (2-5) in Q. The vector field U( - ,t) is weakly continuous as an L*(R*)-valued
function on [0, T| and satisfies U(-,0) = Uy € L>(R3). The solution (u, p) is suitable in Q in the sense
of (2-9), and U satisfies the local energy inequality (2-10) in Q1 and the global energy inequality (2-11)
for almost every 0 <ty < T and forall t, € (t1, T).

Finally, there exists a subsequence, still denoted by n, such that the Calderon solutions u® converge
to u in the following senses: ,

u® s uoin L3 (R3]0, 7)),  p™ —~p in L2 (R3%]0, T)),

u® >y inC(0,T); S (R)). (2-119)
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In particular,
U2 u- ) inS'(RY, 0<t<T. (2-120)

Proof. (1) Splitting. Let us assume the hypotheses of the theorem. There exists a constant 4 > 0 such that

(n)
g Nl gr, sy = A- (2-121)

We will follow the proof of Theorem 2.5. Let ¢ € (p, 00). The constants below are independent of n but
may depend on p,q, T. According to Lemma 2.2, there exists 0 < & < —s,4 such that for all n € N,

u =u" 4 v, (2-122)
where
v e L2®Y), UM 2@y < C(A. M), (2-123)
55+
Ve € B R Vel ooy < M. (2-124)

According to Theorem A.7, we may choose 0 < M <« 1 such that the mild solutions V® with initial
data VO(”) exist on Q7 and satisfy

|kt zakvliy @) e gy = CkD) (2-125)

Q1) —
for all integers k,/ > 0.

(2) Convergence of V®. Due to the estimate (2-125) and the Ascoli—Arzela theorem, we may pass to a
subsequence, still denoted by 7, such that

VWA Y inkETQr),  KVIVO S 0kVY inC(k) (2-126)
for all K C R* x (0, T'] compact and integers k,/ > 0. The Navier—Stokes equations imply
0, VW = —AV® _pdiyy® gy ® (2-127)

in the sense of tempered distributions on Q7, and one may estimate the time derivative d; 4% by the
right-hand side of (2-127):

sup||AV ||L, 2400, + IPdiv v gy®| V2ptar g,y < (2-128)
where 2 —|— = = 1. Hence, there exists a subsequence such that
/ VD (x,)-pdx — / V(x,-)-¢dx inC(0,T]), ¢eSR. (2-129)
R3 R3
By the Calder6n—Zygmund estimates and (2-125), the associated pressures satisfy
L g
0™ := (—=A)~! divdivV® ® v <0 inLZLZ(O7). (2-130)

In particular, the convergence occurs weakly in Lloc(QT)’ By similar arguments to those in Step 1 of
Proposition 2.3, the pressure satisfies O = (—A)~! divdiv V ® V, and (V, Q) solves the Navier—Stokes
equations on Q7 in the sense of distributions. Therefore, since V € IC;" +S(QT) and V(-,1) 2 Vy in
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tempered distributions as ¢ | 0, we conclude that V' is the mild solution of the Navier—Stokes equations
on Q7 with initial data Vj as in Theorem A.7. See [Lemarié-Rieusset 2002, p. 122] for further remarks
on the equivalence between differential and integral forms of the Navier—Stokes equations.

(3) Convergence of U™. ForeachneN,let U™ ¢ L®L2N L%H; (Or), whose existence is guaranteed
by Theorem 2.6, so that the Calderén solution

u® =y Ly (2-131)

g’))). It remains to consider the limit of U ™.

agrees with the mild solution NS (uf)n) ) up to min(7, T*(u
The proof is very similar to the proofs of Proposition 2.3 and Theorem 2.5, so we will merely summarize
what must be done. Recall from Step 1 that ||U(§n) l2®3) = C(A, M). We use the energy inequality and

a Gronwall-type argument to obtain
UP)3 5, <C(4. M). (2-132)

Hence, we may take weak-star limits in the energy space upon passing to a subsequence. As before, we
may estimate the time derivative using the perturbed Navier—Stokes equations. The result is that

19, U < C(4, M). (2-133)

(n)
”L%H;W(QT)

Consequently, we may extract a further subsequence such that U™ — U in L3 (L130 Jx(Qr), the limit

U(-,t) is weakly continuous on [0, 7'] as an L?(R3)-valued function, and
/ UM (x,-) - p(x)dx — / U(x,")-¢(x)dx inC(0,T]), ¢ L*R>. (2-134)
R3 R3

Now recall the associated pressures PW = Pl(n) + Pz("),

PM = (—A) T divdivU P @ U™, (2-135)
P = (—A) N divdivU M @ V) 1 v g U™), (2-136)
By the Calderén—Zygmund estimates, we pass to a subsequence to obtain
3
P® P inL2L}(Qr)., P —~P, inL*Qr). (2-137)
3
PM™ ~pP:=P 4P, inL2(Q7). (2-138)

Since —A Py =divdivU QU and —A P, = divdiv(U @ V + V ® U) in the sense of distributions on O,
we obtain from the Liouville theorem that

P =(-AN)"'divdivU ®U, P,=(-A)"'divdiv(lU®V +V QU). (2-139)

Define p:= P+ Q. Itis clear from the limiting procedure that (i, p) satisfies the Navier—Stokes equations
on Q7 and (U, P) satisfies the perturbed Navier—Stokes equations on Q7. Each is satisfied in the sense
of distributions.
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As in the proofs of Step 2 in Proposition 2.3 and Step 2 in Theorem 2.5, respectively, we may show that
the limit (u, p) is a suitable weak solution of the Navier—Stokes equations on Q7 in the sense of (2-9) and
that (U, P) satisfies the local energy inequality (2-10) on Q7. Moreover, as in Step 3 of Proposition 2.3,
(2-10) implies the global energy inequality (2-11) for almost every 0 < #; < T and for all t, € (¢1, T]. O

3. Proof of main result

We are ready to prove Theorem 1.1. The proof follows the scheme set forth in [Seregin 2012a] except
that we use Calderén solutions to take the limit of the rescaled solutions.

Proof of Theorem 1.1. Let us assume the hypotheses of the theorem. According to the chain of embeddings
(A-48), we have . )
ug € Byg(R*) = By (R?),  m :=max(p.q). (3-1)

By the uniqueness results in Theorem A.2, the notion of mild solution and maximal time of existence are
unchanged by considering the larger homogeneous Besov space. Thus, without loss of generality, we will
assume p = q = m.

(1) Rescaling. Let u be the mild solution of the Navier—Stokes equations with divergence-free initial data

Ug € BIS,’: » (R?) and T*(ug) < oo from the statement of the theorem. In Corollary A.6, we proved that u

must form a singularity at time 7"*(u¢). By the translation and scaling symmetries of the Navier—Stokes

equations, we may assume that the singularity occurs at the spatial origin and time 7*(u¢) = 1.
Suppose for contradiction that there exists a sequence f, 1 1 and constant M > 0 such that

e )l sy = M. (3-2)

The solution u( -, ¢) is continuous on [0, 1] in the sense of tempered distributions (for instance, because u
agrees with a Calder6n solution on Q7). We must have

flu(-, 1)”3;%(@3) =M. (3-3)
Let us zoom in around the singularity. For each n € N, we define
U (x, 1) 1= At Qo x, 1y + A20),  (x.1) € O, (3-4)

where A, := (1 —t,,)%. Then u™ is the mild solution of the Navier-Stokes equations on Q1 with

divergence-free initial data uf)”) = Apu(Ayx,ty), and

g™ g sy < M. (3-5)
Let us pass to a subsequence, still denoted by 7, such that
ul ~ vy in BY,(RY). (3-6)

(2) Limiting procedure. We now apply Theorem 2.7 to the weakly converging sequence (u(()"))neN. For
each n € N, there exists a Calderén solution 4 on Q with initial data ug”) such that 1™ agrees with
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the mild solution NS(uf)”)) on Q. Furthermore, by passing to a subsequence, still denoted by 7, we have
3
u® v inL(01).  p™ g inL2(0)), (3-7)

where (v, q) solves the Navier—Stokes equations in the sense of distributions on Q1 and satisfies the
many additional properties listed in Theorem 2.7. In particular, v € C([0, 1]; S’(R3)). According to
Proposition A.9 concerning persistence of the singularity, the solution v also has a singularity at the
spatial origin and time 7" = 1.
Next, we observe that the solution v vanishes identically at time 7" = 1:
v(-,1)=0. (3-8)
Indeed, Theorem 2.7 implies that

u® (-, )2 u(-, 1) in SR, (3-9)
and by the scaling property of u(-,1) € Bls,’:p (R3),
@ D.0) = (- 1D).220(/An) > 0. ¢ €SE). (3-10)

The property (3-10) is a consequence of the density of Schwartz functions in B;,’: p (R3). It is certainly
true with (-, 1) replaced by a Schwartz function ¥ € S(R?), and therefore,

(o 1), 2520 C /A = KW A2 0 /A |+ 1 (- D) = A5 20 (- /)|

<o) +cluC D=Vl g ool s sy asn—oo,  G-11)
> p'.p
where % + % =1, for all ¢ € S(R?).
(3) Backward uniqueness. Our goal is to demonstrate that
w:=curlv=0 on Q%I. (3-12)
Suppose temporarily that (3-12) is satisfied. From the well-known vector identity Av =V div v—curl curl v,
we obtain
Av=0 on Q%l. (3-13)
Now the Liouville theorem for entire harmonic functions and the decomposition
v=U+VeL*Q)+LPLLQs1), 0<8<1, (3-14)
from Theorem 2.7 imply that v =0 on Q INE This contradicts that v is singular at time 7" = 1 and finishes
the proof.
We will now prove (3-12). Based on (3-14) and
3 a
q=P+QeL2(Q1)+L7Lx(Qs51), 0<8<I, (3-15)
we have
1
lim // w3 4 |g|2 dx dt = 0. (3-16)
lx|—>00 J1 JB(x,1)

Recall from Theorem 2.7 that (v, g) obeys the local energy inequality (2-9), so it is a suitable weak
solution on Q. The e-regularity criterion in Theorem A.8 implies that there exist constants R, x > 0,
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K := (R*\ B(R)) x (3. 1), such that
sup |v] + |Vv| + |V < k. (3-17)
K

Recall the equation satisfied by the vorticity: d;w — Aw = — curl(vVv). This implies
[0;0 — Aw| £ c(|Vo| + |w]) in K (3-18)

for a constant ¢ > 0 depending on . Also, w(-, 1) = 0 due to (3-8). Now, according to Theorem A.10
concerning backward uniqueness, ® = 0 in K.

It remains to demonstrate that @ = 0 in B(R) x (% 1). We claim that there exists a dense open set
G C (0, 1) such that v is smooth on  := R3 x G. With the claim in hand, let zy = (x, %) € 2 N K such
that |xo| = 2 R. Note that w = 0 in a neighborhood of zy. In addition, by the smoothness of v, there exist
0 <& <« 1 and ¢ > 0 depending on z; such that

[0, — Aw| < c(|Vo|+|w|) in Q := B(xg,4R) X (ty — &, 1y + &) C Q. (3-19)

Hence, the assumptions of Theorem A.11 concerning unique continuation are satisfied in Q, and w =0
in Q. This implies that = 0 in R? x (tg — &, ty + &). Since zy € Q N K was arbitrary, we obtain that
o = 0 in Q. Now the density of G and weak continuity v € C([0, 1]; S’(R?)) imply @ = 0 on Q%,r
Finally, we prove the claim that there exists a dense open set G C (0, 1) such that v is smooth
on R3 x G. Recall from Theorem 2.7 that v = U + V, where V is the smooth mild solution in Q
from Theorem A.7 with initial data V. To treat U, consider the set IT of times #; € (0, 1) such that
U(-,t;) € H'(R?) and U satisfies the global energy inequality (2-11) for all #, € (1, 1]. The latter
condition ensures that
U0 =Vl =0 (3-20)

The set IT has full measure in (0,1). For each ¢; € Il, there exist ¢ := &(¢;) > 0, a vector field
U € C([t1, 11 +¢]; HY(R?)), and pressure P € L L3 (Qy, .+, +¢) such that

30 —~AU+divU@U +divV®@U +divi®V =-VP, divU =0, (3-21)
in the sense of distributions on Qy, s, +¢. Furthermore, U is smooth on Ot ,1,+¢- This may be proven by
developing the local well-posedness theory for the integral equation

t
U(-,t) =AU 1) —/ PRV QU +VQRQU+U ®V)ds (3-22)
5]

with U(-, ;) € H'(R?). One must use that 3 V!V e C([5, 1]; L>°(R?)) for all 0 < § < 1 and integers
k,l > 0. By weak-strong uniqueness for (3-21), as in Step 4 in Theorem 2.6, we must have that U = U
on Q¢ 1, +¢- Hence, U is smooth on Qy, s, +-. We define the dense open set G C (0, 1) as follows:

G:=|Ju.n+ew). G2TM=[0.1] (3-23)
Hell

This completes the proof of the claim and Theorem 1.1. O
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Appendix

This appendix has been written with two goals in mind.

The first goal is to unify two well-known approaches to mild solutions with initial data in the critical
homogeneous Besov spaces. Mild solutions in the time-space homogeneous Besov spaces were considered
in the blow-up criterion of Gallagher, Koch and Planchon [Gallagher et al. 2016], whereas mild solutions
in Kato spaces are better suited to our own needs. In Theorem A.2, we prove that the two notions
of solution coincide and have the same maximal time of existence. The third subsection contains the
proof, while the first two are devoted to background material on Littlewood—Paley theory and Besov
spaces. We also address the subcritical theory in Kato spaces in Theorem A.7. Our hope is that the
details provided herein will equip the reader to fill in any fixed-point arguments we have omitted in
Sections 2-3.

The second goal is to collect various results related to the theory of suitable weak solutions. While the
blow-up arguments we have presented are not overly complicated, they do rely on technical machinery
developed by a number of authors starting in the 1970s. We summarize the theory in the fourth subsection
and refer to [Escauriaza et al. 2003] for additional details.

Littlewood—Paley theory and homogeneous Besov spaces. We now summarize the basics of Littlewood—
Paley theory and homogeneous Besov spaces. Our treatment is based on the presentation in [Bahouri
et al. 201 1a, Chapter 2]. The situation is as follows. There exist smooth functions ¢ and x on R3 with
the properties

supp(p) C { e R : 3 <|g] <}, e 7E =1, EeR’\{0}, (A-1)
Jjez

supp(x) C {& € R? : [¢] < $}, XE+Y Q=1 £eR. (A-2)
j=0

For all j € Z, we define the homogeneous dyadic block A ;j and the homogeneous low-frequency cutoff
S ' to be the following Fourier multipliers:

Aj =927/ D), S;:=x27/D). (A-3)

For tempered distributions %o on R, the convergence of the sum Y <0 A juo typically occurs only in
the sense of tempered distributions modulo polynomials; see pp. 28-30 in [Lemarié-Rieusset 2002]. To
remove ambiguity, we will consider the following subspace of tempered distributions on R?:

Sy i={uges: Alim 10(AD)ug | Loog3sy =0 forall 6 € D(R?)}. (A-4)
—>00

The subspace S;l is not closed in the standard topology on tempered distributions. We will often refer
to the condition defining (A-4) as the “realization condition.” Let us recall the family of homogeneous
Besov seminorms, defined for all tempered distributions ¢ on R3:

””0”1};’(1([@3) = szs||Aj”0||LP(R3)”gq(z)v seER, 1=p,qg=o0. (A-5)
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These are norms when restricted to tempered distributions in the class ug € S,’l. We now introduce the
family of homogeneous Besov spaces,

By (%) = {uo € S}t lluoll gy g3y <00}, SER, 1= p.g=oo. (A-6)
This is a family of normed vector spaces. As long as the condition
s<2 or s:%,q:l (A-7)

is satisfied, Bls,’q N B;II,CII(R3) is a Banach space for all s; € Rand 1 < py,¢g; < 00, and there is no
ambiguity modulo polynomials.

Let us now recall a particularly useful characterization of homogeneous Besov spaces in terms of
Kato-type norms. Our reference is [Bahouri et al. 2011a, Theorem 2.34]. Let 0 < T' < co. The following

family of norms is defined for locally integrable functions u € Llloc(QT)3

lulleg o (@7) = [ Olr@n oo ) 5 €R 1Spgsoo  (AB)
We now define the Kato spaces with the above norms:
Kp.g(O1) 1= {u € Lioo(Q1) iy .01 < 00} (A-9)
To simplify notation, we will define
K35(07) =K oo(Q1).  Kp(Or) =K' (O7). (A-10)

The caloric characterization of homogeneous Besov spaces is as follows. For all s < 0, there exists a
constant ¢ := ¢(s) > 0 such that

e uollig 4 (0u0) = uoll gy, ey = clle" ol (000 (A-11)

for all tempered distributions #o on R>.

We now introduce the time-space homogeneous Besov spaces that appear naturally when solving
the Navier—Stokes equations with initial data in homogeneous Besov spaces. Our presentation follows
[Bahouri et al. 2011a, Section 2.6.3]. Let 0 < T' < co. We have the following family of seminorms on
tempered distributions u € S'(Q7):

”””Z’TB,‘,,q = H2]S||Aju0||L;L§(QT) HM(Z)’ seR, 1=<p,q,r <oo. (A-12)
The time-space homogeneous Besov spaces on Q7 are defined below:
L’TB;’q ={ueS(Qr): ||u”Z"TBI§,q < 00,
jiiinoo||sju||L;L§o(QTlgT2) =0 forall0< Ty <T, < T},
seR, 1=<p,q,r <oo. (A-13)

The second condition in (A-13) is analogous to the realization condition (A-4). We have that Z; Bls,’q N

;l Bls,ll .q, 1s a Banach space for all sy € Rand 1 <rq, p1,q; < oo provided that (A-7) is satisfied. To

~

L
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simplify notation, we will omit the reference to 7" in the norm when 7" = co. We also sometimes employ
spaces L§ TBIS), ¢ On the spacetime domain Qs r that are defined in the same way.
We now review the Bony paraproduct decomposition as described in [Bahouri et al. 2011a, Section 2.6].

Consider the operators

Tuv::ZSj_luAjv, R(u,v) := Z AJ‘L{AJ'/U, (A-14)
jez li—jl=1

defined formally for all tempered distributions u,v on R3. These operators represent low-high and
high-high interactions in the formal product

uv = Tuv+Tvu+R(u,v). (A-15)

If the sums defining the paraproduct operators converge, one may use (A-15) to extend the notion of
product to a wider class. Consider

1<p,p1.p2.9.91.92 <00, 5,51,52 €R,

A-16
IS S N S SRS IR (A-10)
P D1 P2 q q1 q2

Then one has the estimates

”Tuv”Bigq(W) <c(s, Sl)”u”B;} .ql(R3)||v||B;§,q2(R3) (provided 51 < 0), (A-17)

IR g sy S €Ol g, w0z, sy (provided s > 0). (A-18)

a2

The additional condition (A-7) will imply that Ty, R(u v) € S;l. The analogous estimates in time-space
homogeneous Besov norms are

ITuvllgr gy, = cCosollulizn g vl g (provided sy <0), (A-19)
3 ~ e < ~r1 5S =ry 5S i -
IRl gy gy, <c@lullzngn  [vlgage — (provideds >0). (A-20)
where
1<rr,r=<oo, l=i+i, 0<T =< o0. (A-21)
r r ry

The paraproduct decomposition will play a crucial role in proving estimates on the nonlinear term.

Heat estimates in homogeneous Besov spaces. In this subsection, we recall estimates for the heat equa-
tion in time-space homogeneous Besov spaces and Kato spaces.

Regarding heat estimates of frequency-localized data, the primary observation is the following; see
[Bahouri et al. 2011a, Section 2.1.2] as well as the appendix of [Gallagher et al. 2016]. Let C C R? be
an annulus and A > 0. There exist constants C, ¢ > 0 depending only on the annulus C such that for all
tempered distributions u satisfying supp(itg) C AC,

_ 2
||etAu0||LP(R3) <Ce luollLr@sy. 1=p=o0, (A-22)
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Let 0 < T < oo and f be a tempered distribution on Q7 with spatial Fourier transform satisfying
supp f C AC x [0, T']. There exists a constant C > 0, depending only on the annulus C, such that

e Buoll o2y = €122 00772 Jugll o s, (A23)
! 11 11
| e sy as e S T V] N A X)
0 L2LY(Qr) e
1<pi=pr=<o0, 1=r=r=o0c. (A-25)

The estimates follow from (A-22) by Bernstein’s inequality and Young’s convolution inequality. As an
application, we obtain

e Buoll7,, goras2rms < Cllwoll g, o): (A-26)
t
(t—s)A .
e Pdiv F(-,s)ds S C||F|=r -s =1, A-27
/ R ”L;B;:%;”' ! 2
1<pi1<py<o00, 1=5¢g1=<gr<00, 1=r;=<r,=<oo. (A-28)

Here, we have employed that P is a homogeneous Fourier multiplier of degree zero smooth away from
the origin; see Proposition 2.40 in [Bahouri et al. 2011a]. Let us now comment on continuity in time.
Regarding the estimates (A-26) and (A-27), the solutions belong to the class C([0, T]; B ;,"2242 (R?)) as
long as r{, g1 < oo and the realization condition in (A-13) is met. For example, the realization condition
is met whenever (sp, 4+ 2/r2, p2,q2) satisfies (A-7). Because the mild solutions we seek exist in spaces
ch}o B;‘:q with 3 < p < oo, realization will often be automatic.

The second set of estimates we will discuss are the estimates in Kato spaces that arise naturally from
the caloric characterization (A-11) of homogeneous Besov spaces. We summarize them in a single lemma:

Lemma A.1 (estimates in Kato spaces). Let 0 < T <ooand 1 < p; < pp < oo such that

3 3
Sp—— =145 ——. A-29
2= 1T ( )
In addition, assume the conditions
sy >—2, -3 (A-30)
2 %)

(For instance, if py = 00, then the latter condition is satisfied when py > 3. If p1 = 2, then the latter
condition is satisfied when p, < 6.) Then

for all distributions F € ICIS,‘] (QT1), and the solution u to the corresponding heat equation belongs to
C((0, T]; LP2(R3)). Let k,1 > 0 be integers. If we further require that

t
| e0spaiv F e = 61 pIF Lt o) (A31)
0

K2 (Q71)

(5 92VPF e K3 (07), (A-32)
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for all integers 0 < a < k and multi-indices B € (Ng)> with |B| <, then we have

ko1
181
< C(k,l,sl,pl,pz)(z Dl Fli (QT))’

t
tk+§8]fvl/ eUTIAPdiv F(-, 1) dt
’C;é(QT) a=0 =0

0

(A-33)
and the spacetime derivatives 8]t‘Vl u of the solution u belong to C((0, T]; LP2(R?)).
Proof. Recall the following estimates on the Oseen kernel [Lemarié-Rieusset 2002, Chapter 11]. Let
o > 0 be an integer and B € (Np)? be a multi-index. Then
3

1(3 _ _IB8|—
194V e AR div g | Lo sy < e, B2 T 7 T T2y (A-34)

forallz > 0and 1 < p; < py < oo. In addition, the semigroup commutes with partial derivatives in the
space variables.

Let us consider the case when «, § are zero. Suppose that s, 52, p1, P2, and F obey the hypotheses
of the lemma. Then

t
/ eUTIAPdiv F(-, 1) dt
0

LP2 (R3)

t
< / e AP div F(-. 0)|| L2 gy dT
0
(A34) ! (33 )
e[ =0t G EC Ol sy de
0

! L(2-32-1) 51 _5
< c[ (t—7)2P2 Pt Vr2drx sup T 2| F(-,0)lLe g3
0

O0<t<T
(A-30) 51 -1 3 3 -1 %(i—i—i-sri-l) ]
= C[(i-l-l) _Z(E_E—i_l) ][ Py P X”FHIC;,I(QT)
(A-29) T(s1 -1 3 3 —17 5o
< c[(? +1) _2(E_E +1) ]z 25 F st oy (A-35)
This completes the proof of the first estimate. Now let us define
t
u(-,1) = / e P div F(s) ds (A-36)
0
for all 0 < ¢ < T and observe the identity
t
u(-, 1) =e ™y (-, 1) +/ eTOAPGy F(-, 1) dt (A-37)
N

for all 0 < s < ¢. To prove that u € C((0, T']; L?2(R3)), one merely estimates

t
luCot) = uCo5) Lo @y < eV 2u(-,5) = u(-.5) | Lo @3y + [ le AP div F(-,7) || Lra @y d T
N

! (23 1) 31
— 2 2 s = -
50(1)+c/s (=072 R dx [Pl g, = 0(1) (A-38)

as |t —s| — 0, according to the assumption (A-30) on the exponents.
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Let us now demonstrate how to prove the estimates on spatial derivatives. One estimates the integral in
two parts,

t
/ Viet=DAPdiv F(-,7)dt
0

LPZ(IR3)

3 _3 _

r
<) [ T—o2 G a1 B dvtef -0 G A vk d
<c() A (t—1) IFCDlm@syde+ef =1) IVEF(-, D)l e w3y dT
2

3

SNTERIUNPg
SC(I)[ (t—1)2\P2 71 rzdrx||F||,C’s)%(QT)
0

! (33 1) 1 /
— )2 3(s1=0) svl . s
+c %(z T)2'r2 1 g2 dt x| T2V F( ’T)HIC,,II(QT)
5 (s2—1) s Sl 1. s ;

The proof of continuity in L”2(R?) is similar to (A-38) except with spatial derivatives in the identity
(A-37).

The proof of estimates on the temporal derivatives is slightly more cumbersome due to the weighted
spaces under consideration and that the temporal derivatives do not preserve the form of the equation. By
differentiating the identity (A-37) in time, one obtains

t
Btu(-,t):B,e(’_s)Au(-,s)+e(’_s)A|PdivF(-,s)+/ CDAP v, F(-, 1) dt,  (A-40)

N

and more generally,

k ¢
Hu(-.1)=0Fe"DPu(- 1)+ Y 3% =4pdiv o F(-.5) +/ eCIAPdivak F(- 1) dr.

a=1 §

(A-41)
(In obtaining the identities, it is beneficial to compare with the differential form of the equation.) Now set

s = %t and denote the terms by I, I1, and 111, respectively. We estimate
17l1zra < ey (- 30)] s

<c(k. p)t ™ 3 |u

sz cor)
< clksi prp)t ™ T Flln g, (A-42)
according to our original estimate. Furthermore,
s <) 3 G o2 Py (30
a=1 .
< cllsi, prp)t ™ T YT F s o, (A-43)

a=1
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and finally,

3

' 3 (55 1) ok
MLz <c | (@ —7)2 2 70 A F( o)l ds
2

! (33 ) 51
—k+>5- k ok
< {—1)2\P2 P 2 ds x " F,
—C/g( T) T § ”T T ”IC;;IZ(QT)

—k+32
< (ks prop)t” T RO F (A-44)

5(Q1)°

This completes the proof of the time-derivative estimates. The proof of continuity is similar to (A-38)
except that one must use the identity (A-41).

Regularity in spacetime may be obtained by applying the temporal estimates to the spatial derivatives,
since the spatial derivatives preserve the form of the equation. O

Mild solutions in homogeneous Besov spaces. The goal of this subsection is to review the well-posedness
theory of the Navier—Stokes equations with initial data in Besov spaces.

Let us recall the notion of a mild solution to the Navier—Stokes equations, i.e., a tempered distribution u
on spacetime that satisfies the integral equation

t
u(-, 1) =etAu0—/ eIAPdivu @ u ds (A-45)
0

in a suitable function space. The operator /2P div is defined by convolution with the gradient of the
Oseen kernel; see Chapter 11 of [Lemarié-Rieusset 2002]. We will often simply write

u(-, 1) =e®ug— Bu,u)(-,1), (A-46)
t

B(v, w)(-,t)::[ eUIAP divy @ w ds. (A-47)
0

Distributional solutions to the Navier—Stokes equations are mild under rather general hypotheses, as
discussed in Chapter 14 of [Lemarié-Rieusset 2002]. Small-data-global-existence in the spirit of the
seminal work [Kato 1984] is known for divergence-free initial data in the spaces

H2 (R — L3R} < B, (RY) < B2, (R?) < BMO™' (R), (A-48)

where 3 < p; < py <00 and 3 < ¢ < ¢» < co. The case BMO™! (R?) was treated in [Koch and Tataru
2001] and appears to be optimal. Ill-posedness has been demonstrated in [Bourgain and Pavlovi¢ 2008]
in the maximal critical space Bgol,oo([R@). Local-in-time existence is known for initial data in the spaces

H2(RY) — L3R} — BY,(R*) = VMO~ (R?) (A-49)
as long as 3 < p,q < 0o, where
VMO (R3) := S(R3)BMO™' (&) (A-50)

The existence theory for initial data in homogeneous Besov spaces is summarized in the following
theorem.
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Theorem A.2 (mild solutions in critical Besov spaces). Let 3 < p,q < o0 and ug € B;’fq (R3) be a
divergence-free vector field. Then there exists a time 0 < T*(ug) < oo and a mild solution u of the

Navier—Stokes equations such that

ueC(0, T By, (R*)NLLBY > nLPBY,, (A-51)
u € Kp(Q1) NKoo(Q1) NC((0, T]; L? N L®(R%)) (A-52)

forall 0 < T < T*(ug). In addition, u is the unique mild solution satisfying (A-51) and the unique mild
solution satisfying (A-52). Lastly, if T*(ug) < 0o, then the following two conditions are satisfied:

i li -t = o0. A-53
©) ITIITEI*HU( N zro w3y = o0 (A-53)
(ii) Forall po € [p,0), qo € [g,00), and 1 < ro < oo such that sp, +2/ro € (0,3/ po),

P17l g gororarre = 00 (A9

In the statement, we have utilized the Banach space

R3(07) = fu € K(0r) : 13 ul-, )l Logesy = 0 as 1 | 0}, (A-55)

We will discuss the proof after reviewing two lemmas concerning quadratic equations in Banach spaces
based on Lemmas A.1 and A.2 in [Gallagher et al. 2002]. See also Lemma 5 in [Auscher et al. 2004].

Lemma A.3 (abstract Picard lemma). Let X be a Banach space, L : X — X a bounded linear operator
suchthat I — L : X — X is invertible, and B a continuous bilinear operator on X satisfying

[B(x, Mlx =vlxlx Iylx (A-56)

for somey >0andall x, y € X. Then for all a € X satisfying
1

(7 — L) allx < : (A-57)
Al -L)xy
the Picard iterates Py (a), defined recursively by
Py(a) :=a, Prii(a):=a+ L(Px)+ B(Px, Py), k=0, (A-58)
converge in X to the unique solution x € X of the equation
x =a+ L(x)+ B(x, x) (A-59)
such that |
lIxllx < - : (A-60)
2l =Ly x y
Regarding the hypothesis on L, the operator I — L : X — X is invertible with norm
1
(7= L)7Hx < (A-61)
1= Lllx

whenever || L|xy < 1. We use this fact in Lemma 2.4 and Theorem 2.6.
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Often one applies Lemma A.3 to an intersection of spaces. For instance, to solve the Navier—Stokes
equations with divergence-free initial data uo € L? N L3(R?), the space X may be chosen as X :=
L} NLPL:N L2H!(Q7). Similarly, one may choose X to include higher derivatives in order to
prove higher regularity. Technically, when one includes more derivatives in the space X, one may need
to shorten the time interval on which Lemma A.3 is applied and argue that the additional regularity is
propagated forward in time. This is cleverly avoided in [Germain et al. 2007].

Lemma A.4 (propagation of regularity). In the notation of Lemma A.3, let E — X be a Banach space.
Suppose that L is bounded on E such that I — L : E — E is invertible and B maps E x X — E and
X x E — E with

max (|| B(y.2)ll e, Bz W) ) =nlylle llzllx (A-62)
forsomen > 0andall y € E, z € X. Finally, suppose that
I =L~ en <=Ly xy. (A-63)
For all a € E satisfying (A-57), the solution x from Lemma A.3 belongs to E and satisfies
IxIle <211 = L) al g (A-64)

Lemma A.4 does not require the quantity ||¢| g to be small, but one may have to increase y > 0 in
order to meet the condition (A-63).

Proof of Theorem A.2. Let us assume the hypotheses of Theorem A.2. Let r > 2 such that s, + % € (0, %)

(1) Constructing a local-in-time mild solution. To obtain local-in-time solutions, we will apply Lemma A.3
to the integral formulation (A-45) of the Navier—Stokes equations in the Banach space
~ .5 +Z o
Xr:=L%Byg "NKyQOr). (A-65)

Note that the realization condition in (A-13) is satisfied, so the time-space homogeneous Besov space in
(A-65) is complete.

Let us prove that the bilinear operator B is bounded on X7. In fact, it is bounded separately on the
two spaces in the intersection. To prove that B is bounded on K, (Q1), we use Holder’s inequality,

4 ® vl 2 5, = llley @ 1Vl @), (A-66)
and conclude with the heat estimates in Lemma A.1. That the subspace l%p(QT) is stabilized follows
from taking the limit 7" | 0. To prove boundedness on L7, BIS,’:; 2/ ", we use the Bony decomposition

(A-15). First, apply the low-high paraproduct estimate (A-19) and Sobolev embedding to obtain

||Tuv||Z"T/ZBI;tII}i-2Sp+4/V = C”””Z;B;{;}'Z/V HUHNQ-B;{’;'ZN = c”u”"rTB[AJ‘{a;Z/I‘ ||U||Z%B;{7q+2/r- (A-67)
The analogous estimate is valid for Tyu. Now we combine the heat estimate (A-27), substituting
F := Tyv + Tyu, with the low-high paraproduct estimate:

= C”””Z’TB;{’;Z/' ”v”Z’TBffq“/"' (A-68)

t
/ eIAP div(T,v + Tyu) ds
0 Ly Byt
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To estimate the high-high contribution, we apply the property (A-20) to obtain

||R(u, v)|| 2(3p+2/r) < C||u|| 3,,+2/r ||v|| sp+2/r (A-69)

LB,

Notice that 2(sp + %) € (0, %), so the realization condition in (A-13) is satisfied. We then apply the

heat estimate (A-27) with F := R(u, v) to obtain

ir B, pt+2/r ||u|| SP+2/’ v ” B;{’q+2/r' (A-70)

t
/ eUIAP div R(u, v) ds
0

This completes the proof of boundedness in L; B;,‘:; 2fr

The last step in applying Lemma A.3 is to obtain the smallness condition (A-57). Since ug € B;,” q (R3),
we have from (A-11) and (A-26) that

"2 up € Xoo, le"ugllx, =0 as T | 0. (A-71)

Hence, (A-57) will be satisfied as long as 0 < 7" < 1 depending on uq. This completes Step 1.

(2) Further properties of mild solutions. Our next goal is to prove that a given mild solution, u € Xr
belongs to the full range of function spaces stated in the theorem. It is clear from (A-11) and (A-26) that
e"Auyq is in the desired spaces, so we will focus on the mapping properties of the nonlinear term.

First, suppose u is a mild solution in I%p(QT). The integral equation (A-45) combined with the
estimates in Lemma A.1 allow one to bootstrap u into the space I%OO(QT). The same estimates in

Lemma A.1 also give u € C((0, T]; L? N L*°(R?)). We conclude that u belongs to (A-52).

Now suppose u is a mild solution in Z’T BIS,"; 2T We may combine the paraproduct estimates (A-67)
and (A-69) in Step 1 with the heat estimates (A-27) to obtain the mapping property
B LLBY M < Lr BT (0. T): B, (R*) N L BY,. (A-72)

Demonstrating u € L! Bp”q requires a bootstrapping argument that we borrow from Remark A.2 of
[Gallagher et al. 2002]. Specifically, suppose that u € L2 B}, F2/70 o some g > 1 such that sp+2/ro > 0.
Let us define the exponents
1 l—¢ 3 1 1 1 2
_ = — — — _— = — _ < —_ -
o) 5 300 1@ T ro +l(8)’ 0<e<sp+ o (A-73)

l(s)B

2/1
From interpolation, it is clear that u € L s" +2/ (8) Now consider the additional restrictions & > 0

and r;(¢) > 1. One may verify that

2 2 2 2
s +@——8, s1(e) = 2sp+ +l() Sp+%—8>0. (A-74)
According to the paraproduct laws (A-19) and (A-20), we have
7% ull 7 egne + || R(u, w)llz egne = c”“”ZIT(s)B;,Z||u||ZrT°B};{’q+2/r0' (A-75)

We then apply the heat estimate (A-27) to obtain

B(u.u)e L@ B, ’1‘8’, (A-76)
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provided that 0 < & < s, +2/r¢ and r1(¢) > 1. In fact, by repeating the arguments with a new value
1 <7y < rg, one may treat the case ¢ = 0. The final result is that

~max(1,r1) pSpTmin (2,72) 1 s, 1
B(u,u) € L YBp.q L w2 T (A-77)
Hence, one may improve 1/r¢ by the fixed amount —s, /2 at each iteration. This completes the boot-

strapping argument, so # belongs to the class (A-51).

(3) Uniqueness. Suppose that uy, u, are two mild solutions on Q7 in the class (A-51) with the same
initial data u¢. For contradiction, assume there exists a time 0 < Ty < 7" such that u; = u;, on Qr, but
uy and uy are not identical on Qr, 1,45 for all 0 < § < T — T. Because the solutions are continuous
with values in B;,%([R@), we must have @9 ;= uy(-, Ty) = u2(-, Tp). When 0 < § < 1, depending on
uy and uy, the two solutions on Qr, 1,+s With the same initial data u¢ fall into the perturbative regime
of Lemma A.3 in the critical time-space homogeneous Besov spaces. Hence, the solutions coincide on
Or,,T,+8> Which is a contradiction.

Similarly, suppose that u1, u#, are two mild solutions on Q7 in the class (A-52). For 0 < § < 1
depending on u; and u5, the solutions on Qg fall into the perturbative regime of Lemma A.3 in the Kato
space /%p(Q(g). Hence, the solutions coincide on a small time interval. Uniqueness may be propagated
forward in time according to the subcritical theory in L?(R?3).

(4) Characterizing the maximal time of existence. We now return to the mild solution u that we constructed
in Step 1. The solution may be continued according to the subcritical theory in L?(R3) and the critical
theory in time-space homogeneous Besov spaces. The result is the following. There exists a time
0 < T*(ugp) < oo such that for all 0 < 7" < T*(ug), u is the unique mild solution in X7 with initial
data u, and for all T > T*(uy), the solution u cannot be extended in X7. The time T*(u¢) is the maximal
time of existence of the mild solution u with initial data . In the proof, we will denote it simply by 7%

Suppose that T* < co. Then limg 47+ ||u|x,; = oo, since otherwise the solution can be continued
past T* A priori, we know that

i) lim |lu(-,¢ 3 = or (ii") lim |ul=, sop+2/r = 00. A-78
(1 ) tTlT*”u( )”LP(R3) (0. ¢] (11 ) T%«T*”u”L%Bp{’;_z/ o0 ( )

Note that we may avoid writing lim sup, 4« [[u( -, )| L» g3y In (i") because the L? (R3) norm is subcritical.
It is immediate that (i) implies (i’) and (ii) implies (ii"). We will now demonstrate the implications in
the reverse direction.

Suppose that (i) does not hold. In other words, there exists p < po < oo such that u € Kp,(Q1+). By
the bootstrapping in Kato spaces mentioned in Step 2, we obtain that

U € Koo(Qr+) N C((0, T*]; L¥(R?)). (A-79)

Then, we may apply Lemma A.4 concerning propagation of regularity in the spaces X = L*°(Qr)
and E = X N L LY(Qr) with initial data u(-,%) € L? N L®(R3) and initial time 7y close to T*
The lemma prevents ||u(-, )| » g3y from blowing up as ¢ 1 T, so (i") does not hold. This is the same
argument as in the last step of Proposition A.5.
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Now suppose that (ii) does not hold. Then there exists p < po < 00, ¢ < g¢ < 00, and r¢ > 2 such
2 .
that s, +2/r¢ € (0,3/po) and u € L2, B;’(’)"qt /ro . By the arguments in Step 2, we must have that

w e C(0, T Byoy) N Lhw BYOa? N ISR B0, (A-80)
As in the previous paragraph, we may apply Lemma A.4 in the spaces X = Lr 0 Bls,f)o;(_)z/ro E =
XN L’ Bs"+2/r with initial data u(-,ty) € Bls,”q N BI,0 70 (R?) and initial time ¢y close to T* This

o +2/r stays bounded, so (ii’) fails. Here it is crucial that u(-,?)

proves that the norm of u in L’T*B
is continuous on [0, 7*] with values in B p’(’)oqo (R?), so that the existence time of the solution with initial data
u( -, to) has a uniform lower bound. This was not an issue in the subcritical setting. Also, we do not record

here the bilinear estimates necessary to apply Lemma A.4. They are similar to the estimates in Step 1.

(5) More characterizing. It remains to prove that (i') is equivalent to (ii’). To begin, we will show that
(ii) implies (i’) by arguing the contrapositive. Suppose

sup  Jlu(-, D)l L3y < oo. (A-81)
Ir+<e<T*

By the subcritical theory in L?(R?3), it is not difficult to show that

sup  [[Vu(-,)llLr w3y < oo (A-82)
ST*<t<T*

One may interpolate between (A-81) and (A-82) to obtain for all 0 <s < 1,

sup  fu(-. Ol gs @sy =) supJu(, t)lls @yl t)ll @y <00 (A8
T*<t<T* b LT*<t<T*
see Proposition 2.22 in [Bahouri et al. 2011a]. Now, let m := max(q, r). By Minkowski’s and Holder’s
inequalities,

ssp+2/r = |ull

u ~
lullz, g

sp+2/r <c(T* ) sup ||”('»l)||Bspl+2/r(R3) < 00,
p,

L (B i
IT*<t<T*

)x(Qrx/27%) —

(A-84)
and one concludes that (ii) fails.

Now we will demonstrate that (i) implies (ii’), again by arguing the contrapositive. Let us assume
that ||u || B < 00, so that by the mapping properties of the nonlinear term in Step 2,

u e C(0, T*]; By (R)). (A-85)
Our goal is to prove that the following quantity is bounded:

||u||ZC7>%T*BS/qI7(R3) < oo (A_86)

for some 0 < Ty < T* Indeed, interpolating between (A-85) and (A-86), one may demonstrate that

sp+1
su u(-,t < su u(-,t ”s u s < 00. A-87
To<t£T*” (- )”BO (R3) T StET*” (.0l 5 (Rg,)” (- )“ p+1(R3) ( )

In light of the embedding 32,1 (R?) < LP(R?), this will complete the proof that (i’) fails.
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To prove (A-86), we will need more estimates for the heat equation. Let C C R? be an annulus and
A>0.Let0 < T <ooand f be atempered distribution on Q7 with spatial Fourier transform satisfying
supp f C AC x [0, T]. Then

t
y zE/ DA £ Dy de
0

LLY(Qr)

2(L_1 gy 3(Ll_1L 1 (A-88)
<t ”2)(||f||L’;1LZI(QT)+“|”f||L§1L§1(QT))’
I1<pi1<py=<oo, 1=<r;<ry=<ooc.

Recall the smoothing effect (A-22) of the heat flow. When p; = p,, one may write

t
A (t—1)A .
[ oescmas

LP1(R3)

L t
2
<c /0 IVeT=D2 £ (- 0) 1 sy d T+ A f 12 £ o) o sy
2
2 -1 —c(t—1)A? ! —c(t—t)A%_—1, 3
<c[fu-ote 1/ C Dy dr+Ch [ e A SO sy d
0 3

£ t
2
< Ct 3 (/ o c(t—1)A? 1/ D)l Lo gy ds + )\/t o c(t—A? ”.L.%f( O ey @) d‘L’) (A-89)
0 2

and treat the subsequent integration in time by Young’s convolution inequality. The case p, > p; follows
from Bernstein’s inequality. This leads us to a higher regularity estimate in Besov spaces analogous to
Lemma A.1:

t
15/ cU=IAP div F(-,5)ds
0

= (”F” 11B3p1+2/r1 1+ ”tl/zF”"rlBSpl-i-Z/r) (A-90)
T

L2 p3/r2 P1-41

T *p2.492

when also 1 < ¢g; < g, < o0.
Let us return to the proof. We will apply Lemma A.3 in the following Banach spaces to obtain (A-86):

Yy = Tr 'sp+ r ;+2
ri={e LLBY T e LN BRI, (A-91)

Ivllyy := max(|v] ;, sp+2/r,lll Ollgr garpearr). (A-92)

Let us show that B is a bounded operator on Y7 with norm « independent of the time 7" > 0. We need
only prove boundedness of the upper part of the norm. Now, according to the low-high paraproduct
estimate (A-19) and Sobolev embedding,

1
I3 Tz ovarr < ellvlizy ool wlizy sypears

1
S C”v”ZrI‘Blsfj»Z/r ||[2L()||i,7-qu./qp+2/r f CHUHYT ”quT, (A—93)
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and similarly for T3, v. According to the high-high estimate (A-20), we have

102 R@.w) | g2 ysosprarr < ellvlly grzrel2wliz, oo <clvllyy [y, (A-94)
Since v, w € X, there is no ambiguity modulo polynomials in forming the paraproduct operators. The
bilinear estimate is then completed by combining (A-90) with (A-67), (A-93) for the low-high terms and
(A-69), (A-94) for the high-high terms. By the same paraproduct estimates and applying (A-90) with
r, = 00, one may show that

B:YrxYr — C((0,T]; Bp%,q(u%%). (A-95)

This is the property we will use below.

We are ready to conclude. Recall that u € C([0, T*]; Bls,fq R3)) by (A-85). By continuity, there exists
a time 77 > 0 such that ||e’Au(-,tO)||YT1 < (4x)" ! asty 1 T* Now we may apply Lemma A.3 in the
space Y7, with u(-, T* —T}) as initial data, and the result agrees with the mild solution « on the time
interval [T* — Ty, T*]. Therefore, we may take T := T* — %T 1 in (A-86) to complete the proof. (In
fact, by similar arguments of resolving the equation, one may show that (A-86) holds everywhere away
from the initial time.) O

Let us also provide the following characterization of the maximal time of existence.

Proposition A.5 (formation of singularity at blow-up time). Let 3 < p < oo and uy € L?(R?) be
a divergence-free vector field. Let T*(ug) > 0 be the maximal time of existence of the unique mild
solution u such that u( - ,t) is continuous in L? (R3). If T*(uy) < 0o, then u must have a singular point
at time T*(uyp).

Proof. This argument is based on similar arguments in [Rusin and Sverdk 2011; Jia and Sverak 2013]. Let
u be as in the hypothesis of the proposition and assume that 7*(u¢) < co. Following [Calder6n 1990],
for all § > 0, there exist divergence-free vector fields Uy € L2(R*)N L?(R?) and V € L?(R3) such that

ug = Uy + 1, ||V0||Lp(R3) <. (A-96)

Let V denote the unique mild solution associated to the initial data V{, such that V(-,¢) is continuous
in L?(R3). Furthermore, one may choose 0 < § < 1 such that 7*(Vy) > 2T *(uy). We will abbreviate
T*(ug) as T* The remainder U solves the perturbed Navier—Stokes equations on Q7+,

0 U—-AU+divUQU +divUQV +divI U =-VP, divU =0, (A-97)

with the initial condition U(-, 0) = U,. By the well-posedness theory for (A-97) as well as the energy
inequality, one may prove that U is in the energy space up to the blow-up time:

UeL®LENL?HN Q7). (A-98)
Based on the decomposition of u, we obtain
ue L’ (Qr) + L LE(QT), (A-99)

peL3(Qre)+ LPLI(Or+). (A-100)
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where p := (—A)~!divdivu ® u is the pressure associated to 1. Recall now that u is in subcritical
spaces, so one may justify the local energy inequality for (u, p) up to the blow-up time 7* Moreover,
(A-99) implies

T*
lim / / u|? + | p|2 dx dt = 0. (A-101)
B(x,1)

Ix|—>00 Jo
Therefore, by the e-regularity criterion in Theorem A.8, there exist constants R,k > 0 and the set

K := (R*\ B(R)) x (§T*, T*) such that

sup |u(x, )| <«. (A-102)
K

Finally, suppose that u has no singular points at time 7'* This assumption, paired with the estimate
(A-102), implies that u € L>(Q, 7+) for some ¢ € (3T* T*). Consider the bilinear estimates

1
[ B(v, w)||eopp =cT2|llpeepropllwliLer)
f x(@1) f x(Q@71) (Qr) (A-103)

1
B w)llpeerr(ory = T2 vliLeo@mllwliLeorr s

for all T > 0. Now one applies Lemma A.4 with the bilinear estimates (A-103) and the choice of spaces
X :=L%Q,1+)., E:=XNLPLE(Qs,1+) (A-104)

for each & <o < T™ This prevents |[u(-,?)|| 13y from becoming unbounded as ¢ 1 7* and completes
the proof. O

Corollary A.6. Let u be the mild solution of Theorem A.2 with initial data ug. If T*(ug) < 0o, then u
has a singular point at time T *(u).

Lastly, we record an existence theorem for mild solutions with initial data in subcritical Besov spaces.
Similar results concerning smoothness of solutions belonging to the critical space L3(Q7) were proven
in [Dong and Du 2007].

Theorem A.7 (mild solutions in subcritical Besov spaces). Let3 < p,q <00, 0 <& < —sp, s:=5p +¢,
and M > 0. There exists a positive constant k := k(s, p) such that for all divergence-free vector
fields ug € B q(R3) with ||u0||Bs J®3) = =< M, there exists a unique mild solution u € KC;,(Qr) of the

Navier-Stokes equations on Qr wzth initial data uy and T 3=k /M. Moreover, the solution satisfies
3 V!u e C((0, TT: LP(®R*) N C((0. T): L®(RY)), (A-105)
L L
15205V ul ey 0y + ||zk+za§v’u||,cgol+g(QT) <c(s, p.k,hM (A-106)
for all integers k,l > 0. Hence, u is smooth in Q.

e-regularity and backward uniqueness. In this section, we record a number of important theorems
relevant for the blow-up procedure in Theorem 1.1. Our primary reference is the seminal paper of
Escauriaza, Seregin, and Sverdk [Escauriaza et al. 2003].
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We will now introduce the relevant notation and definitions. For R > 0 and z¢ = (x¢, %) € R3T1, we
define the Euclidean balls

B(xo.R) :={yeR®:|xo—y| <R}, B(R):= B(0,R), (A-107)
and the parabolic balls
Q(z0, R) := B(xo, R) x (to— R*,19),  Q(R):= Q(0, R). (A-108)

Suppose that u : Q(zg, R) — R? is a measurable function. We will say that z is a singular point of
u if for all 0 < r < R, we have u & L°°(Q(z¢,r)). In this case, we will say that u is singular at z.
Otherwise, we will say that zq is a regular point of u.

We say that (v, q) is a suitable weak solution of the Navier—Stokes equations in Q(zg, R) if the
following requirements are satisfied:

3
() ve L¥LEINLIH(O(z0. R)) and g € L}, (Q(z0, R)).
(ii) (v, q) solves the Navier-Stokes equations in the sense of distributions on Q(zg, R).
(iii) For all 0 < ¢ € C§°(B(R) X (fo — R?, 1)), the pair (v, ¢) satisfies the local energy inequality

t

/ elv(x,t)|>dx +2 f @|Vv|* dx dt’
B(xo,R) to—R? JB(x9,R)
t
E/ / (|v|2(Ago+8t<p)+v-ch(|v|2+2q)) dx dt’, (A-109)
to—R2 JB(xy,R)

for every ¢ € (o — R?, 1o].

We say that (v, ¢) is a suitable weak solution of the Navier-Stokes equations in an open set @ C R3T1 if
(v, ¢) is a suitable weak solution in each parabolic ball O C Q.

Note that we permit the test functions ¢ in the local energy inequality to be supported near 7, but this
is not strictly necessary. Also, one may use the Navier—Stokes equations to demonstrate that a suitable
weak solution u( -, ¢) is weakly continuous on [fo — R?, fo] as a function with values in L2(B(x, R)).

Let us show that the distributional local energy inequality (2-9) in the definition of Calderén solution
implies the local energy inequality (A-109) in the definition of suitable weak solution. Let 0 < n € C5°(R)
such that n = 1 when |t] < i, n = 0 when |7| > %, and [pndt = 1. For all & > 0, define 7,(7) :=
e Ine 7). Nowlet 0 < g € CgP(B(R) X (1o — R?, 1y]). Define

t/
CD,,g(x,t’):zw(x,z’)(l—/ ng(t—t)dt), te(to—R* 1), &>0. (A-110)

o0

Using ®; ¢ as a test function in (2-10) and passing to the limit ¢ | 0 proves (A-109) for almost every
t € (to — R?, tp). That the inequality is true for all ¢ € (fo — R?, ty] follows from the weak continuity of
u(-,t) € L>(B(x, R)).

We will now state the Caffarelli-Kohn—Nirenberg e-regularity criterion for suitable weak solutions;
see [Caffarelli et al. 1982; Lin 1998; Ladyzhenskaya and Seregin 1999; Escauriaza et al. 2003].
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Theorem A.8 (e-regularity criterion [Escauriaza et al. 2003]). There exist absolute constants ¢ > 0 and
cok >0, k € N, with the following property. Assume (v, q) is a suitable weak solution on Q(1) satisfying

/ w3 4 |g|2 dx dt < eo. (A-111)
o)
Then, for each k € N, we know V&=1y is Holder continuous on Q(%) and satisfies
sup |Vk_1v(x,t)| <Cok- (A-112)
o(3)

The e-regularity criterion may be used to prove that singularities of suitable weak solutions persist
under locally strong limits.

Proposition A.9 (persistence of singularity [Rusin and Sverak 20111]). Let (vg,qx) be a sequence of
suitable weak solutions on Q(1) such that vy — v in L*(Q(1)), qx — q in L%(Q(l)) Assume vy is
singular at (xx, t) € O(1) and (xj, ty) — 0. Then v is singular at the spacetime origin.

Finally, we recall two theorems concerning backward uniqueness and unique continuation of solutions
to differential inequalities.

Theorem A.10 (backward uniqueness [Escauriaza et al. 2003]). Let Q4+ = Ri x (0,1). Suppose
u: Q1 — R3 satisfies the following conditions:

(1) |ur + Au| < c(|Vul| + |u|) a.e. in Q4+ for some ¢ > 0.
(i) u(-,0)=0.
(i) [u(x, )| <eM*in Q.
(iv) w,u;, V?u € LE(LE )x(0+4).
Thenu=0o0n Q4.

To make sense of condition (ii), one may use that u € C([0, 1]; D’ ([Rii)), due to condition (iv).

Theorem A.11 (unique continuation [Escauriaza et al. 2003]). Let R, T > 0 and Q(R,T) := B(R) x
0,7) C R3*L. Suppose u: Q(R, T) — R3 satisfies the following conditions:

G) w,u;,V’ue L>2(Q(R,T)).

(1) |us + Au| < c(|Vu| + |u|) a.e. in Q(R, T) for some ¢ > 0.
(i) |u(x,?)] < Ce(|x| + v2)¥ in O(R, T) for some Cy > 0, all k > 0.
Then u(x,0) =0 forall x € B(R).

Acknowledgments

The author would like to thank his advisor, Vladimir Sversk, as well as Daniel Spirn, Alex Gutierrez,
Laurel Ohm, and Tobias Barker for valuable suggestions. The author also thanks the reviewer for a careful
reading of the manuscript.



BLOW-UP CRITERIA FOR THE NAVIER-STOKES EQUATIONS IN NON-ENDPOINT CRITICAL BESOV SPACES 1455

References

[Albritton and Barker 2018] D. Albritton and T. Barker, “Global weak Besov solutions of the Navier—Stokes equations and
applications”, preprint, 2018. arXiv

[Auscher et al. 2004] P. Auscher, S. Dubois, and P. Tchamitchian, “On the stability of global solutions to Navier—Stokes
equations in the space”, J. Math. Pures Appl. (9) 83:6 (2004), 673-697. MR Zbl

[Bahouri et al. 2011a] H. Bahouri, J.-Y. Chemin, and R. Danchin, Fourier analysis and nonlinear partial differential equations,
Grundlehren der Mathematischen Wissenschaften 343, Springer, 2011. MR Zbl

[Bahouri et al. 2011b] H. Bahouri, A. Cohen, and G. Koch, “A general wavelet-based profile decomposition in the critical
embedding of function spaces”, Confluentes Math. 3:3 (2011), 387-411. MR Zbl

[Bahouri et al. 2014] H. Bahouri, J.-Y. Chemin, and I. Gallagher, “Stability by rescaled weak convergence for the Navier—Stokes
equations”, C. R. Math. Acad. Sci. Paris 352:4 (2014), 305-310. MR Zbl

[Barker 2017] T. Barker, “Existence and weak™* stability for the Navier—Stokes system with initial values in critical Besov
spaces”, preprint, 2017. arXiv

[Barker 2018] T. Barker, “Uniqueness results for weak Leray—Hopf solutions of the Navier—Stokes system with initial values in
critical spaces”, J. Math. Fluid Mech. 20:1 (2018), 133-160.

[Barker and Seregin 2017] T. Barker and G. Seregin, “A necessary condition of potential blowup for the Navier—Stokes system
in half-space”, Math. Ann. 369:3-4 (2017), 1327-1352. MR Zbl

[Barker et al. 2013] T. Barker, G. Seregin, and V. Sverdk, “On stability of weak Navier—Stokes solutions with large £3- initial
data”, preprint, 2013.

[Bourgain and Pavlovi¢ 2008] J. Bourgain and N. Pavlovié¢, “Ill-posedness of the Navier—Stokes equations in a critical space
in 3D”, J. Funct. Anal. 255:9 (2008), 2233-2247. MR Zbl

[Caffarelli et al. 1982] L. Caffarelli, R. Kohn, and L. Nirenberg, “Partial regularity of suitable weak solutions of the Navier—Stokes
equations”, Comm. Pure Appl. Math. 35:6 (1982), 771-831. MR Zbl

[Calder6n 1990] C. P. Calderén, “Existence of weak solutions for the Navier-Stokes equations with initial data in L?”, Trans.
Amer. Math. Soc. 318:1 (1990), 179-200. MR Zbl

[Dong and Du 2007] H. Dong and D. Du, “On the local smoothness of solutions of the Navier—Stokes equations”, J. Math. Fluid
Mech. 9:2 (2007), 139-152. MR Zbl

[Dong and Du 2009] H. Dong and D. Du, “The Navier—Stokes equations in the critical Lebesgue space”, Comm. Math. Phys.
292:3 (2009), 811-827. MR Zbl

[Escauriaza et al. 2003] L. Escauriaza, G. A. Seregin, and V. Sverik, “L 3 oo-solutions of Navier-Stokes equations and backward
uniqueness”, Uspekhi Mat. Nauk 58:2(350) (2003), 3—44. In Russian; translated in Russian Math. Surveys 58:2 (2003), 211-250.
MR Zbl

[Gallagher 2001] 1. Gallagher, “Profile decomposition for solutions of the Navier—Stokes equations”, Bull. Soc. Math. France
129:2 (2001), 285-316. MR Zbl

[Gallagher et al. 2002] I. Gallagher, D. Iftimie, and F. Planchon, “Asymptotics and stability for global solutions to the Navier—
Stokes equations”, exposé VI in Journées “Equations aux Dérivées Partielles” (Forges-les-Eaux, 2002), Univ. Nantes, 2002.
MR Zbl

[Gallagher et al. 2013] 1. Gallagher, G. S. Koch, and F. Planchon, “A profile decomposition approach to the L?O(L;) Navier—
Stokes regularity criterion”, Math. Ann. 355:4 (2013), 1527-1559. MR Zbl

[Gallagher et al. 2016] I. Gallagher, G. S. Koch, and F. Planchon, “Blow-up of critical Besov norms at a potential Navier—Stokes
singularity”, Comm. Math. Phys. 343:1 (2016), 39-82. MR Zbl

[Germain et al. 2007] P. Germain, N. Pavlovi¢, and G. Staffilani, “Regularity of solutions to the Navier—Stokes equations
evolving from small data in BMO™'”, Int. Math. Res. Not. 2007:21 (2007), art. id. rnm087. MR Zbl

[Jia and Sverdk 2013] H. Jia and V. Sverak, “Minimal L3-initial data for potential Navier-Stokes singularities”, SIAM J. Math.
Anal. 45:3 (2013), 1448-1459. MR Zbl

[Kato 1984] T. Kato, “Strong L2 -solutions of the Navier—Stokes equation in R™, with applications to weak solutions”, Math. Z.
187:4 (1984), 471-480. MR Zbl


http://msp.org/idx/arx/1802.03164
http://dx.doi.org/10.1016/j.matpur.2004.01.003
http://dx.doi.org/10.1016/j.matpur.2004.01.003
http://msp.org/idx/mr/2062638
http://msp.org/idx/zbl/1107.35096
http://dx.doi.org/10.1007/978-3-642-16830-7
http://msp.org/idx/mr/2768550
http://msp.org/idx/zbl/1227.35004
http://dx.doi.org/10.1142/S1793744211000370
http://dx.doi.org/10.1142/S1793744211000370
http://msp.org/idx/mr/2847237
http://msp.org/idx/zbl/1231.42034
http://dx.doi.org/10.1016/j.crma.2014.02.007
http://dx.doi.org/10.1016/j.crma.2014.02.007
http://msp.org/idx/mr/3186918
http://msp.org/idx/zbl/1294.35056
http://msp.org/idx/arx/1703.06841
http://dx.doi.org/10.1007/s00021-017-0315-8
http://dx.doi.org/10.1007/s00021-017-0315-8
http://dx.doi.org/10.1007/s00208-016-1488-9
http://dx.doi.org/10.1007/s00208-016-1488-9
http://msp.org/idx/mr/3713543
http://msp.org/idx/zbl/06798247
http://dx.doi.org/10.1016/j.jfa.2008.07.008
http://dx.doi.org/10.1016/j.jfa.2008.07.008
http://msp.org/idx/mr/2473255
http://msp.org/idx/zbl/1161.35037
http://dx.doi.org/10.1002/cpa.3160350604
http://dx.doi.org/10.1002/cpa.3160350604
http://msp.org/idx/mr/673830
http://msp.org/idx/zbl/0509.35067
http://dx.doi.org/10.2307/2001234
http://msp.org/idx/mr/968416
http://msp.org/idx/zbl/707.35118
http://dx.doi.org/10.1007/s00021-005-0193-3
http://msp.org/idx/mr/2329262
http://msp.org/idx/zbl/1128.35081
http://dx.doi.org/10.1007/s00220-009-0852-y
http://msp.org/idx/mr/2551795
http://msp.org/idx/zbl/1216.35085
http://dx.doi.org/10.4213/rm609
http://dx.doi.org/10.4213/rm609
http://dx.doi.org/10.1070/RM2003v058n02ABEH000609
http://msp.org/idx/mr/1992563
http://msp.org/idx/zbl/1064.35134
http://dx.doi.org/10.24033/bsmf.2398
http://msp.org/idx/mr/1871299
http://msp.org/idx/zbl/0987.35120
http://msp.org/idx/mr/1968202
http://msp.org/idx/zbl/1027.35090
http://dx.doi.org/10.1007/s00208-012-0830-0
http://dx.doi.org/10.1007/s00208-012-0830-0
http://msp.org/idx/mr/3037023
http://msp.org/idx/zbl/1291.35180
http://dx.doi.org/10.1007/s00220-016-2593-z
http://dx.doi.org/10.1007/s00220-016-2593-z
http://msp.org/idx/mr/3475661
http://msp.org/idx/zbl/1342.35217
http://dx.doi.org/10.1093/imrn/rnm087
http://dx.doi.org/10.1093/imrn/rnm087
http://msp.org/idx/mr/2352218
http://msp.org/idx/zbl/1148.35063
http://dx.doi.org/10.1137/120880197
http://msp.org/idx/mr/3056752
http://msp.org/idx/zbl/1294.35065
http://dx.doi.org/10.1007/BF01174182
http://msp.org/idx/mr/760047
http://msp.org/idx/zbl/0545.35073

1456 DALLAS ALBRITTON

[Kenig and Koch 2011] C. E. Kenig and G. S. Koch, “An alternative approach to regularity for the Navier—Stokes equations in
critical spaces”, Ann. Inst. H. Poincaré Anal. Non Linéaire 28:2 (2011), 159-187. MR Zbl

[Kenig and Merle 2006] C. E. Kenig and F. Merle, “Global well-posedness, scattering and blow-up for the energy-critical,
focusing, non-linear Schrédinger equation in the radial case”, Invent. Math. 166:3 (2006), 645-675. MR Zbl

[Kikuchi and Seregin 2007] N. Kikuchi and G. Seregin, “Weak solutions to the Cauchy problem for the Navier—Stokes equations
satisfying the local energy inequality”, pp. 141-164 in Nonlinear equations and spectral theory, edited by M. S. Birman and
N. N. Uraltseva, Amer. Math. Soc. Transl. Ser. 2 220, Amer. Math. Soc., Providence, RI, 2007. MR Zbl

[Koch 2010] G. S. Koch, “Profile decompositions for critical Lebesgue and Besov space embeddings”, Indiana Univ. Math. J.
59:5 (2010), 1801-1830. MR Zbl

[Koch and Tataru 2001] H. Koch and D. Tataru, “Well-posedness for the Navier—Stokes equations”, Adv. Math. 157:1 (2001),
22-35. MR Zbl

[Ladyzhenskaya and Seregin 1999] O. A. Ladyzhenskaya and G. A. Seregin, “On partial regularity of suitable weak solutions to
the three-dimensional Navier—Stokes equations”, J. Math. Fluid Mech. 1:4 (1999), 356-387. MR Zbl

[Lemarié-Rieusset 2002] P. G. Lemarié-Rieusset, Recent developments in the Navier—Stokes problem, Research Notes in
Mathematics 431, CRC, Boca Raton, FL, 2002. MR Zbl

[Leray 1934] J. Leray, “Sur le mouvement d’un liquide visqueux emplissant ’espace”, Acta Math. 63:1 (1934), 193-248. MR
Zbl

[Lin 1998] F. Lin, “A new proof of the Caffarelli-Kohn—Nirenberg theorem”, Comm. Pure Appl. Math. 51:3 (1998), 241-257.
MR Zbl

[Maekawa et al. 2017] Y. Maekawa, H. Miura, and C. Prange, “Local energy weak solutions for the Navier—Stokes equations in
the half-space”, preprint, 2017. arXiv

[Phuc 2015] N. C. Phuc, “The Navier—Stokes equations in nonendpoint borderline Lorentz spaces”, J. Math. Fluid Mech. 17:4
(2015), 741-760. MR Zbl

[Rusin and Sverdk 2011] W. Rusin and V. Sverak, “Minimal initial data for potential Navier—Stokes singularities”, J. Funct.
Anal. 260:3 (2011), 879-891. MR Zbl

[Seregin 2012a] G. Seregin, “A certain necessary condition of potential blow up for Navier—Stokes equations”, Comm. Math.
Phys. 312:3 (2012), 833-845. MR Zbl

[Seregin 2012b] G. Seregin, “Leray—Hopf solutions to Navier—Stokes equations with weakly converging initial data”, pp.
251-258 in Mathematical aspects of fluid mechanics, edited by J. C. Robinson et al., London Math. Soc. Lecture Note Ser. 402,
Cambridge Univ. Press, 2012. MR Zbl

[Seregin 2015] G. Seregin, Lecture notes on regularity theory for the Navier—Stokes equations, World Scientific, Hackensack,
NJ, 2015. MR Zbl

[Seregin and Sverak 2017] G. Seregin and V. Sverdk, “On global weak solutions to the Cauchy problem for the Navier—Stokes
equations with large L 3-initial data”, Nonlinear Anal. 154 (2017), 269-296. MR Zbl

[Serrin 1962] J. Serrin, “On the interior regularity of weak solutions of the Navier—Stokes equations”, Arch. Rational Mech.
Anal. 9 (1962), 187-195. MR Zbl

[Wang 2008] C. Wang, “Heat flow of harmonic maps whose gradients belong to L% L?°”, Arch. Ration. Mech. Anal. 188:2
(2008), 351-369. MR Zbl

Received 20 Feb 2017. Revised 3 Dec 2017. Accepted 14 Feb 2018.

DALLAS ALBRITTON: albri050@umn.edu
School of Mathematics, University of Minnesota, Minneapolis, MN, United States

mathematical sciences publishers :'msp


http://dx.doi.org/10.1016/j.anihpc.2010.10.004
http://dx.doi.org/10.1016/j.anihpc.2010.10.004
http://msp.org/idx/mr/2784068
http://msp.org/idx/zbl/1220.35119
http://dx.doi.org/10.1007/s00222-006-0011-4
http://dx.doi.org/10.1007/s00222-006-0011-4
http://msp.org/idx/mr/2257393
http://msp.org/idx/zbl/1115.35125
http://dx.doi.org/10.1090/trans2/220/07
http://dx.doi.org/10.1090/trans2/220/07
http://msp.org/idx/mr/2343610
http://msp.org/idx/zbl/1361.35130
http://dx.doi.org/10.1512/iumj.2010.59.4426
http://msp.org/idx/mr/2865431
http://msp.org/idx/zbl/1230.46030
http://dx.doi.org/10.1006/aima.2000.1937
http://msp.org/idx/mr/1808843
http://msp.org/idx/zbl/0972.35084
http://dx.doi.org/10.1007/s000210050015
http://dx.doi.org/10.1007/s000210050015
http://msp.org/idx/mr/1738171
http://msp.org/idx/zbl/0954.35129
http://dx.doi.org/10.1201/9781420035674
http://msp.org/idx/mr/1938147
http://msp.org/idx/zbl/1034.35093
http://dx.doi.org/10.1007/BF02547354
http://msp.org/idx/mr/1555394
http://msp.org/idx/zbl/60.0726.05
http://dx.doi.org/10.1002/(SICI)1097-0312(199803)51:3<241::AID-CPA2>3.0.CO;2-A
http://msp.org/idx/mr/1488514
http://msp.org/idx/zbl/0958.35102
http://msp.org/idx/arx/1711.04486
http://dx.doi.org/10.1007/s00021-015-0229-2
http://msp.org/idx/mr/3412277
http://msp.org/idx/zbl/1326.35249
http://dx.doi.org/10.1016/j.jfa.2010.09.009
http://msp.org/idx/mr/2737400
http://msp.org/idx/zbl/1206.35199
http://dx.doi.org/10.1007/s00220-011-1391-x
http://msp.org/idx/mr/2925135
http://msp.org/idx/zbl/1253.35105
http://dx.doi.org/10.1017/CBO9781139235792.013
http://msp.org/idx/mr/3050300
http://msp.org/idx/zbl/1296.35124
http://msp.org/idx/mr/3289443
http://msp.org/idx/zbl/1314.35001
http://dx.doi.org/10.1016/j.na.2016.01.018
http://dx.doi.org/10.1016/j.na.2016.01.018
http://msp.org/idx/mr/3614655
http://msp.org/idx/zbl/1361.35134
http://dx.doi.org/10.1007/BF00253344
http://msp.org/idx/mr/0136885
http://msp.org/idx/zbl/0106.18302
http://dx.doi.org/10.1007/s00205-007-0102-4
http://msp.org/idx/mr/2385745
http://msp.org/idx/zbl/1156.35052
mailto:albri050@umn.edu
http://msp.org

ANALYSIS AND PDE
Vol. 11, No. 6, 2018

dx.doi.org/10.2140/apde.2018.11.1457

DOLGOPYAT’S METHOD AND THE FRACTAL UNCERTAINTY PRINCIPLE

SEMYON DYATLOV AND LONG JIN

We show a fractal uncertainty principle with exponent % —8+¢, &> 0, for Ahlfors—David regular subsets
of R of dimension § € (0, 1). This is an improvement over the volume bound % — &, and ¢ is estimated
explicitly in terms of the regularity constant of the set. The proof uses a version of techniques originating
in the works of Dolgopyat, Naud, and Stoyanov on spectral radii of transfer operators. Here the group
invariance of the set is replaced by its fractal structure. As an application, we quantify the result of
Naud on spectral gaps for convex cocompact hyperbolic surfaces and obtain a new spectral gap for open
quantum baker maps.

1. Introduction

A fractal uncertainty principle (FUP) states that no function can be localized close to a fractal set in both
position and frequency. Its most basic form is

1A Frlao 2@ —r2@ = OHP) ash— 0, (1-1)

where A(h) is the h-neighborhood of a bounded set A C R, 8 is called the exponent of the uncertainty
principle, and Fj, is the semiclassical Fourier transform:

Fpu(g) = (2nh)—%Ae—”fu(x) dx. (1-2)

We additionally assume that A is an Ahlfors—David regular set (see Definition 1.1) of dimension § € (0, 1)
with some regularity constant Cg > 1. Using the bounds || Fp ;2572 = 1, | Fallpiopee < h=2, the
Lebesgue volume bound sz, (A(h)) < Ch =%, and Holder’s inequality, it is easy to obtain (1-1) with
B = max(O, % — 8).

Fractal uncertainty principles were applied by Dyatlov and Zahl [2016], Dyatlov and Jin [2017], and
Bourgain and Dyatlov [2016] to the problem of essential spectral gap in quantum chaos: which open
quantum chaotic systems have exponential decay of local energy at high frequency? A fractal uncertainty
principle can be used to show local energy decay (’)(e_ﬂ "), as was done for convex cocompact hyperbolic
quotients in [Dyatlov and Zahl 2016] and for open quantum baker’s maps in [Dyatlov and Jin 2017]. Here
A is related to the set of all trapped classical trajectories of the system and (1-1) needs to be replaced by a
more general statement, in particular allowing for a different phase in (1-2). The volume bound 8 = % -6
corresponds to the Patterson—Sullivan gap or more generally, the pressure gap. See Sections 4-5 below
for a more detailed discussion.

MSC2010: 28A80, 35B34, 81Q50.
Keywords: resonances, fractal uncertainty principle.
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A natural question is: can one obtain (1-1) with 8 > max(O, % — 8), and if so, how does the size of the
improvement depend on § and Cr? Partial answers to this question have been obtained in the papers
mentioned above:

e Dyatlov and Zahl [2016] obtained FUP with 8 > 0 when ‘8 — %‘ is small depending on Cg, and
gave the bound B > exp(—K (1 +log!* CR)), where K is a global constant.

e Bourgain and Dyatlov [2016] proved FUP with 8 > 0 in the entire range § € (0, 1), with no explicit
bounds on the dependence of 8 on §, Cg.

¢ Dyatlov and Jin [2017] showed that discrete Cantor sets satisfy FUP with 8 > max(O, % — 8) in the
entire range § € (0, 1) and obtained quantitative lower bounds on the size of the improvement —
see Section 5 below.

Our main result, Theorem 1, shows that FUP holds with 8 > % — & in the case § € (0, 1), and gives
bounds on 8 — % + & which are polynomial in Cg and thus stronger than the ones in [Dyatlov and Zahl
2016]. Applications include

e an essential spectral gap for convex cocompact hyperbolic surfaces of size § > % —§, recovering
and making quantitative the result of [Naud 2005], see Section 4;

e an essential spectral gap of size f > max (O, % — 8) for open quantum baker’s maps, extending the
result of [Dyatlov and Jin 2017] to matrices whose sizes are not powers of the base, see Section 5.
(For the case § > % we use the results of [Bourgain and Dyatlov 2016] rather than Theorem 1.)

1A. Statement of the result. We recall the following definition of Ahlfors—David regularity, which
requires that a set (or a measure) has the same dimension § at all points and on a range of scales:

Definition 1.1. Let X C R be compact, iy be a finite measure supported on X, and § € [0, 1]. We say
that (X, py) is 8-regular up to scale h € [0, 1) with regularity constant Cg > 1 if

e for each interval  of size |I| > h, we have ux(I) < Cg|I|’;
e if additionally |/| <1 and the center of [ lies in X, then uy (/) > CEl |1)%.

Our fractal uncertainty principle has a general form which allows for two different sets X, ¥ of different
dimensions in (1-1), replaces the Lebesgue measure by the fractal measures py, 1y, and allows a general
nondegenerate phase and amplitude in (1-2):

Theorem 1. Assume that (X, jux) is 8-regular, and (Y, py) is §'-regular, up to scale h € (0, 1) with

constant Cr, where 0 < 68,8’ < 1,and X C Iy, Y C Jo for some intervals Iy, Jog. Consider an operator
By LY(Y, uy) — L®(X, ux) of the form

5= [ (52 )60 0y dnr ) (13

where ®(x,y) € C%(Iy x Jo; R) satisfies 8)20,(1) £ 0and G(x, y) € C1(Iy x Jo; C).
Then there exist constants C, g9 > 0 such that

I1BullL2 v,y )—>L2(X .y ) < CHEC. (1-4)
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Here g depends only on 8, 8, Cg,
g0 = (SCR)_go(ﬁ-’_m), (1-5)
and C additionally depends on Iy, Jo, D, G.

Remarks. (1) Theorem 1 implies the Lebesgue-measure version of FUP, (1-1), with exponent 8 =
% — & + &9. Indeed, assume that (A, p) is §-regular up to scale i with constant Cg. Put X := A(h)
and let y be A%~ times the restriction of the Lebesgue measure to X. Then (X, jux) is §-regular up to
scale i with constant 30C122; see Lemma 2.2. We apply Theorem 1 with (¥, uy) := (X, ux), G = 1, and
®(x,y) = —xy; then

1-s

1_
1Lam Falac l2@—r2@ = o= 1Bl 12t < Ch2 Seo

(2) Definition 1.1 is slightly stronger than [Bourgain and Dyatlov 2016, Definition 1.1] (where “up to
scale h” should be interpreted as “on scales % to 1””) because it imposes an upper bound on py (1) when
|7| > 1. However, this difference is insignificant as long as X is compact. Indeed, if X C [—R, R] for
some integer R > 0, then using upper bounds on p7, on intervals of size 1 we get ur (1) < up(X) <
2RCRg <2RCRg|I|® for each interval I of size || > 1.

(3) The restriction 8,8 > 0 is essential. Indeed, if 8 = 0, Y = {0}, wy is the delta measure, and f =1,
G =1, then

1Br fllL2(x,ux) = V Hx (X).

The restriction §, 8" < 1 is technical; however, in the application to Lebesgue-measure FUP this restriction
is not important since f = % — &+ &0 < 0 when § is close to 1.

(4) The constants in (1-5) are far from sharp. However, the dependence of &9 on Cg cannot be removed
entirely. Indeed, [Dyatlov and Jin 2017] gives examples of Cantor sets for which the best exponent &g
in (1-4) decays polynomially as Cr — o0; see Proposition 3.17 of that paper. See also Sections SB-5C.

1B. Ideas of the proof. The proof of Theorem 1 is inspired by the method originally developed by

Dolgopyat [1998] and its application to essential spectral gaps for convex cocompact hyperbolic surfaces

by Naud [2005]. In fact, Theorem 1 implies a quantitative version of Naud’s result; see Section 4. More

recently, Dolgopyat’s method has been applied to the spectral-gap problem by Petkov and Stoyanov

[2010], Stoyanov [2011; 2012], Oh and Winter [2016], and Magee, Oh and Winter [Magee et al. 2017].
We give a sketch of the proof, assuming for simplicity that G = 1. For f € L2(Y, uy), we have

1Bn fllL2x.ux) < Virx Xy Y) - fll L2, uy)s (1-6)

applying Holder’s inequality and the bound [|Bx||11(x, jux)—>Lo0(v,uy) < 1. However, under a mild
assumption on the differences between the phases ®(x, y) for different x, y, the resulting estimate is not
sharp, as illustrated by the following example where X =Y = {1,2}, ux(j) =uy(j) = % for j =1,2,
and wjg 1= ®(j, £)/ h:
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Lemma 1.2. Assume that wjg € R, j, = 1,2, satisfy

T:=w11 + Wi — w12 — w21 ¢ 2nZ. (1-7)

(ul) _1 (exp(iwu) exp(ia)lz)) (fl)
u ) 2 \exp(iwz1) exp(iwn) ) \ f2)°

Assume that (f1, f2) # 0. Then

For fi, f> € C, put

i+ u2l® < [ AP+ 1 o) (1-8)
Remark. Note that (1-8) cannot be replaced by either of the statements

[ur| + lua| <|fil +1/2],  max(Juil, [uz]) <max(] fil,]/2]).

Indeed, the first statement fails when f; =0, f> = 1. The second one fails if w11 = w3 and f1 = fo = 1.
This explains why we use L2 norms in the iteration step, Lemma 3.2.

Proof. We have

2
3 ([ + [u2l?) < max(lui |2 jua?) < (341 +142D) < 5(A1P + 141 (1-9)
Assume that (1-8) does not hold. Then the inequalities in (1-9) have to be equalities, which implies that
lui] = |uz2l, |fil=|f2| >0, and fora =1, 2,

exp(i (wa1 — wa2)) f1.f2 > 0.
The latter statement contradicts (1-7). O
To get the improvement /%0 in (1-4), we use the nonsharpness of (1-6) on many scales:

o We fix a large integer L > 1 depending on §, Cg and discretize X and Y on scales 1, L1, ... L™K,
where i ~ L™K This results in two trees of intervals Vy, Vy, with vertices of height k corresponding to
intervals of length ~ L7k,

e For each interval J in the tree Vy, we consider the function

1 _1P(x, )
P = e <0 Y mas ).

where y is the center of J. The function F; oscillates on scale //|J|. Thus both F; and the rescaled
derivative h|J |71 F 7 are controlled in uniform norm by || f||11(y,,,)- We express this fact using the
spaces Cg introduced in Section 2B.

e If J1,..., Jp € Vy are the children of J, then F; can be written as a convex combinationof Fy,, ..., Fj,
multiplied by some phase factors e’ Y7 ; see (3-12). We then employ an iterative procedure which estimates
a carefully chosen norm of F; via the norms of Fy,,..., Fj,. Each step in this procedure gives a gain
1 — &1 < 1 in the norm, and after K steps we obtain a gain polynomial in /.

 To obtain a gain at each step, we consider two intervals I € Vx, J € Vy such that |I|-|J| ~ Lh, take
their children Iy,...,1I4 and Jy,..., Jp, and argue similarly to Lemma 1.2 to show that the triangle
inequality for e Y1y, ..., !B Jp cannot be sharp on all the intervals Iy, ..., I4.
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e To do the latter, we take two pairs of children I,, I/, (with generic points in I,,, I/ denoted by x4, X4/)
and J,, Jé. Due to the control on the derivatives of Fy,, the differences |Fy, (xq) — Fj, (xq/)| and
|Fj,, (xa) — F,,(xq)| are bounded by (Lh)™YJ|-|xa — xa’|. On the other hand, the phase shift 7

from (1-7) equals
T = Yp(xa) + Wy (xar) — Wpr (xa) — Wp(xar) ~ h_l(xa —Xa’) (Vb — Yir)-

Choosing a,a’, b, b" such that |xg —x4/| ~ L3 |, |yp—ypr |~ L3 |J ], and recalling that |7 |-|J | ~ Lh,
we see that T ~ L™3 does not lie in 27Z and it is larger than (Lh) ™| J |- |xq — Xa/| ~ L~3. This gives
the necessary improvement on each step. Keeping track of the parameters in the argument, we obtain the
bound (1-5) on &g.

This argument has many similarities with the method of Dolgopyat mentioned above. In particular, an
inductive argument using L2 norms appears for instance in [Naud 2005, Lemma 5.4], which also features
the spaces Cg. The choice of children 1,, I/, Jp, Jp/ in the last step above is similar to the nonlocal
integrability condition (NLIC); see for instance [Naud 2005, Sections 2 and 5.3]. However, our inductive
Lemma 3.2 avoids the use of Dolgopyat operators and dense subsets, see for instance [Naud 2005, p.138],
instead relying on strict convexity of balls in Hilbert spaces, see Lemma 2.7.

Moreover, the strategy of obtaining an essential spectral gap for hyperbolic surfaces in the present paper
is significantly different from that of [Naud 2005]. The latter uses zeta-function techniques to reduce
the spectral-gap question to a spectral radius bound of a Ruelle transfer operator of the Bowen—Series
map associated to the surface. The present paper instead relies on microlocal analysis of the scattering
resolvent in [Dyatlov and Zahl 2016] to reduce the gap problem to a fractal uncertainty principle, thus
decoupling the dynamical aspects of the problem from the combinatorial ones. The role of the group
invariance of the limit set, used in [Naud 2005], is played here by its §-regularity, proved by Sullivan
[1979], and words in the group are replaced by vertices in the discretizing tree.

1C. Structure of the paper.

e In Section 2, we establish basic properties of Ahlfors—David regular sets (Section 2A), introduce the
functional spaces used (Section 2B), and show several basic identities and inequalities (Section 2C).

In Section 3, we prove Theorem 1.

e In Section 4, we apply Theorem 1 and the results of [Dyatlov and Zahl 2016] to establish an essential
spectral gap for convex cocompact hyperbolic surfaces.

e In Section 5, we apply Theorem 1 and the results of [Dyatlov and Jin 2017; Bourgain and Dyatlov
2016] to establish an essential spectral gap for open quantum baker’s maps.
2. Preliminaries

2A. Regular sets and discretization. An interval in R is a subset of the form I = [c, d], where ¢ < d.
Define the center of I by %(c +d) and the size of I by |I| =d —c.
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Let u be a finite measure on R with compact support. Fix an integer L > 2. Following [Dyatlov and
Zahl 2016, Section 6.4], we describe the discretization of i with base L. For each k € Z, let V}, be the
set of all intervals I = [c, d] which satisfy the following conditions:

e c,delL*7.

e Foreach ¢ € L™F7 with ¢ < ¢ < d, we have u([g,q + L~%]) > 0.

o px(fe =LK c]) = p(ld.d + L7*]) = 0.

In other words, V% is obtained by partitioning R into intervals of size L7k, throwing out intervals of
zero measure (4, and merging consecutive intervals.
We define the set of vertices of the discretization as

V=[]
kez

and define the height function by putting H(I) := k if I € V. (It is possible that V. intersect for
different k, so formally speaking, a vertex is a pair (k, ), where I € V}..) We say that I € V} is a parent
of I" € Viy1, and I’ is a child of I, if I’ C I. Tt is easy to check that the resulting structure has the
following properties:

 Any two distinct intervals I, I’ € Vj are at least L7k apart.
* w(R\sey, 1) =0forall k.
e Each I € Vj has exactly one parent.
e If ] € Vjand Iy,..., I, € Vi1 are the children of /, then
n
0<u(l)=) nll). 2-1)
i=1
For regular sets, the discretization has the following additional properties:

Lemma 2.1. Let L > 2, K > 0 be integers and assume (X, px) is 8-regular up to scale L™K with
regularity constant Cg, where 0 < § < 1. Then the discretization of uy with base L has the following
properties:

(1) Each I € V with 0 < H(I) < K satisfies, for Cly := (3C2) 773,

LD < 1) < CpL~HD), (2-2)
Cr'L7HW < yx (1) < Cr(CR)’L™HD, (2-3)
Q) If I'isachildof I €V and0 < H(I) < K, then
pr() L7 24
px(I) — Cpg

(3) Assume that
6
L > (4CR)30-5 . (2-5)
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efenneaes | 1 1 1 1 posnneees i--

Figure 1. An illustration of the proof of the upper bound in (2-2). The ticks mark points
in L~%7, the solid interval is I , the dots mark the points x4, and the shaded intervals are
1. The intervals of length L% adjacent to I have zero measure [ty.

Then for each I € V with0 < H(I) < K, there exist two children I, I" of I such that
2
%CIEXL_H(I)_% <|x'—x"| < 21 ~HD-3 forallx' el x" eI”.

Remark. Parts (1) and (2) of the lemma state that the tree of intervals discretizing py is approximately
regular. Part (3), which is used at the end of Section 3B, states that once the base of discretization L is
large enough, each interval I in the tree has two children which are ~ L~HU -3 apart from each other.
A similar statement would hold if % were replaced by any number in (0, 1).

Proof. (1) Put k := H(I). The lower bound on || follows from the construction of the discretization. To
show the upper bound, assume that / = [¢,d] and d —c¢ = ML™¥. Foreach g € L™%7Z withc <¢ < d,
we have wy ([¢, ¢ + L™K]) > 0; thus there exists Xg€lq.q+ L7%]NX. Let I, be the interval of size L%
centered at xg; see Figure 1. Then

(U ta) = pclle = L75d + L7 = () < CotL ™
q

On the other hand, each point is covered by at most three intervals /,; therefore

MCR'L™ <3 ux(1y) < 3ux (U Iq)-
q

q
Together these two inequalities imply M < C, giving (2-2).
The upper bound on ux (1) follows from (2-2). To show the lower bound, take x € I N X and let I’
be the interval of size L™K centered at x. Then ux (I’ \ I) = 0; therefore ux (I) > ux (I’) > CElL_Sk.
(2) This follows directly from (2-3) and the fact that C3(C I,Q)S <Cg.

(3) Putk:= H(I). Take x € I N X and let J be the interval of size L~%=3 centered at x. Let I,.... I
be all the intervals in Vi which intersect J; they all have to be children of /. Let x1, ..., x, be the
centers of 11, ..., I,. Define
T:= LK+3 mezx |x; — xg].
Js

By (2-2), we have |/;| < CI/QL_"_1 and thus T < 1+CI/QL_%. On the other hand, the union of /1, ..., I,

. . . . . 2 g
is contained in an interval of size TL %3 +C kL k=1 Therefore

n
CRILTF3) <y (1) < 37 pux (1) < CR(TLT*5 4 CpL7* 1),
ji=1

EEIN]
W=

This implies T > Cp® — CRL73.
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Now, put I’ := I;, I" = I, where j, £ are chosen so that T = Lk+%|xj — x¢|. Then for each x’ € I,
x"" € I", we have by (2-5)

_2 _2

LT < Cr? —2CRL73 < LFH3|x — x| < 142CRL73 <2. O

We finally have the following estimates on the Lebesgue measure of neighborhoods of a §-regular set,
which are used in Sections 4-5:

Lemma 2.2. Assume that (A, pLp) is 6-regular up to scale h € (0, 1) with constant Cg. Let X := A(h) =
A + [—h, h] be the h-neighborhood of A and define the measure Ly by

px(A) = up (X NA4), ACR, (2-6)

where py, denotes the Lebesgue measure. Then (X, jux) is 8-regular up to scale h with constant C :=
30C3.
Proof. We follow [Dyatlov and Zahl 2016, Lemma 7.4]. Let / C R be an interval with |/| > h. Let
X1,...,xNy € AN I(h) be a maximal set of 2/-separated points. Denote by /,, the interval of size h
centered at x,. Since /,, are disjoint and their union is contained in /(24), which is an interval of size
|1|+ 4h <5]|I|, we have
N
N-CR'h® <) ually) < pa(I(2h) < 5CrII|. (2-7)
n=1

Next, let I, be the interval of size 6/ centered at x,,. Then X N[ is contained in the union of [, and thus

N
pL(X N1 <) ur(ln) = 6hN. (2-8)

n=1

Together (2-7) and (2-8) give the required upper bound
px (1) =h*" up (X 0 1) < 30CH| 1%,

Now, assume additionally that |/| <1 and [ is centered at a point in X. Let yq,...,ypy € ANI bea
maximal set of s-separated points. Denote by [, the interval of size 2h centered at y,,. Then AN is

contained in the union of [,; therefore
M

CM 1P <pa)=pa(AND) < Y uaUm) <M -2Crh". (2-9)
m=1
Next, let 1,, be the interval of size & centered at y,,. Then I,, C X are nonoverlapping and each 7,, N I
has size at least %h; therefore
M
pL(X 00z Y pr(, 01z zMh. (2-10)
m=1

Combining (2-9) and (2-10) gives the required lower bound

1
px () =" (x 0y =z —111°, O
4Cx
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2B. Functional spaces. For a constant # > 0 and an interval I, let Cg(/) be the space C () with the
norm

I llegry = maX(Sl;p |f1. 011 “sup 1£'1)-
The following lemma shows that multiplications by functions of the form exp(i 1) have norm 1 when
mapping Cq (/) into the corresponding space for a sufficiently small subinterval of /:
Lemma 2.3. Consider intervals
I'cl, |I'l<hn. (2-11)
Assume that W € C*°(I;R) and 0 > 0 are such that

40|1'| -sup [y'| < 1. (2-12)
I/

Then for each f € Cy(I), we have | exp(i V) fllc, 17y =< I f lleyr) and
011l “sup [exp ) £ < 51/ llegr)- (2-13)
Proof. The left-hand side of (2-13) is bounded from above by
OI'|(sup ' 1+ sup ).
From (2-12), (2-11) we get
o11'| “sup W' f1< 2l fllegry. 61| “sup |1 < 30 Nl

which finishes the proof of (2-13). The bound (2-13) implies || exp(i V') f llc, 17y =< I f ey (1)- O
The following is a direct consequence of the mean value theorem:
Lemma 2.4. Let f € Cy(I). Then forall x,x’ € I, we have

/ |x — x,l
| f(x) = f(xD)] SW-IIJ‘IICG(I)- (2-14)
2C. A few technical lemmas. The following is a two-dimensional analog of the mean value theorem:
Lemma 2.5. Let [ = [c1,d1] and J = [c2, d3] be two intervals and ® € C?(I x J; R). Then there exists
(x0, y0) € I x J such that

(D(Cl, Cz) + q)(dl, dz) — CD(cl, dz) — @(dl,CQ) = |]| . |J| . a)zcy(D(X(), y()).

Proof. Replacing ®(x, y) by ®(x, y)—P(c1, y)—D(x, c2) +P(c1, ¢2), we may assume that (cy, y) =0
and ®(x,c) =0forall x € I, y € J. By the mean value theorem, we have ®(dy, d2) = |I]-9xP(x0, d2)
for some xo € I. Applying the mean value theorem again, we have dx®(xo, d2) = |J |- chyd)(xo, yo) for
some yg € J, finishing the proof. O

Lemma 2.6. Assume that T € R and |t| < 7. Then |e'® — 1| > %|r|.
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Proof. We have

le'" — 1| = 2sin(3]7]).
It remains to use that sin x > %x when 0 < x < %, which follows from the concavity of sin x on that
interval. O

The next lemma, used several times in Section 3B, is a quantitative version of the fact that balls in
Hilbert spaces are strictly convex:

Lemma 2.7. Assume that H is a Hilbert space, f1,..., fu € H, p1,...,pn >0,and p1 +---+ py = 1.

Then
n
> o pif
j=1
If moreover for some ¢, R > 0

n
Y pilfil =R,
j=1

=Y pilfilz = D pipdfi— fill3 (2-15)
j=1

2
H 1<j<{<n

2
> (1—€)R, Ppmin:=minp; > 2/ (2-16)
H J

n

Y pifi
j=1
then for all j
VR < || filln <2VR. (2-17)

Proof. The identity (2-15) follows by a direct computation. To show (2-17), note that by (2-15) and (2-16)

for each j, ¢
eR

15 = fel < 5— < 3R
min
Put
Smax 1= mlax I fillzes  finin = n}m 5 M-
Then
fmax - frnin = %\/E, fmin <VR= fmaXa
which implies (2-17). O

Lemma 2.8. Assume thataj, p; >0, j=1,...,n, p1+---+ py =1, and for some &, R > 0
n
pra] = (I—S)R, maX(XJ < R, Pmin -= mlnpj > e.
, ] E
j=1
Then for all j,
R.

(Sl

aj >
Proof. We have "
Z pj(R—oj) <eR.
j=1
All the terms in the sum are nonnegative; therefore for all j

eR
Pmin

R. O

. 1
R_ajf 55
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3. Proof of Theorem 1

3A. The iterative argument. In this section, we prove the following statement which can be viewed
as a special case of Theorem 1. Its proof relies on an inductive bound, Lemma 3.2, which is proved
in Section 3B. In Section 3C, we deduce Theorem 1 from Proposition 3.1, in particular removing the
condition (3-1).

Proposition 3.1. Let §,8' € (0,1), Cr > 1, 1o, Jo C R be some intervals, G € C'(1y x Jo; C), and the
phase function ® € C2(1y x Jo; R) satisfy

3 <102, ®(x.y)| <2 forall (x.y) € Iox Jo. (3-1)
Choose constants C 1/3 > 0 and L € N such that
Ch = (2CR) @1, L > (2CH(6CR)FT)S. (3-2)

Fix Ky € Ng and put h := LK for some K € Ng, K >2Kq. Assume that (X, uy) is §-regular, and
(Y, y) is 8 -regular, up to scale LX0~K with regularity constant Cg, and X C Iy, Y C Jo. Put

st 4, — log(1 —e¢1)
=107(Cp Y Cr L2, = 3-3
€1 ( R R) 210gL ( )
Then for some C depending only on Ko, G, ux (X), uy (Y), and By, defined in (1-3),
1Bhf L2 ux) < CHON fllL2uyy forall f e L2(Y, py). (3-4)

Remark. Proposition 3.1 has complicated hypotheses in order to make it useful for the proof of Theorem 1.
However, the argument is essentially the same in the following special case which could simplify the
reading of the proof below: § =6, G =1, ®(x,y) = xy, Ko = 0. Note that in this case By, is related
to the semiclassical Fourier transform (1-2).

To start the proof of Proposition 3.1, we extend ® to a function in C2(R?; R) such that (3-1) still holds,
and extend G to a function in C ! (R?; C) such that G, 3G are uniformly bounded. Following Section 2A,
consider the discretizations of wy, ny with base L, denoting by Vy, Vy the sets of vertices and by H
the height functions.

Fix f € L?(Y, juy). For each J € Vy, let y; denote the center of J and define the function of x € R

1 [(D(x,y) — D(x,
P = [ e (MEEDL 2D Gy 100 dr ) (3-5)
pry(J) Js h
In terms of the operator By from (1-3), we may write
1 i®(x,yy)
o) = — s exp( -2 s ) 36
Put |

0= W (3-7)
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Figure 2. An illustration of (3-8) in the case K = 1. The vertical lines mark the endpoints
of intervals in Vx and the horizontal lines mark the endpoints of intervals in Vy. The
thick lines correspond to intervals of height O and the thin lines to intervals of height 1.
The shaded rectangles have the form I x J, I € Vx, J € Vy, where E; is constant on /,
and the shaded rectangles on the left/right correspond to the left-/right-hand sides of (3-9)
for H(J) = 0.

and for J € Vy define the piecewise constant function E; € L°°(X, ux) using the space Cy(I) defined
in Section 2B:

Ey(x) = ||Fslleyry. where x € I € Vy, H(I)+ H(J) =K. (3-8)

See Figure 2. Note that | Fy(x)| < Ej(x) for uyx-almost every x.

The L? norms of the functions E satisfy the following key bound, proved in Section 3B, which
gives an improvement from one scale to the next. The use of the L? norm of E; as the monotone
quantity is convenient for several reasons. On one hand, the averaging provided by the L? norm means it
is only necessary to show an improvement on F; in sufficiently many places; more precisely we will
show in (3-11) that such improvement happens on at least one child of each interval I € V(X) with
H(I)+ H(J) = K — 1. On the other hand, such improvement is obtained by a pointwise argument
which also uses that the F, are slowly varying on each interval / with H(I)+ H(J) = K — 1 (see
Lemma 3.7); this motivates the use of Cg(/) norms in the definition of £, .

Lemma 3.2. Let J € Vy with Ko < H(J) < K — Ky and J1,...,Jp € Vy be the children of J. Then,
with €1 defined in (3-3),

2 MY(Jb) 2
”EJ”Lz(X,p,X) = (1 1) Z (J) Jb“Lz(X,,uX)' (3-9)

Iterating Lemma 3.2, we obtain:

Proof of Proposition 3.1. First of all, we show that for all J € Vy with H(J) = K — Ky, and some
constant Cy depending on G, ux (X) and defined below, we have

112200

2
IET 72 10y) < Co ) (3-10)
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Indeed, take /I € Vx such that H(/) = Kg. By (2-2) and (3-1), forall y € J

T Sup [0 B(x, ) — D B(x, y)| < 21| < 2CHLE0
hxe[

and thus by (2-2) and (3-7)

40|1
L sup 6 0(x, )~ 20y < 1
xel
Arguing similarly to Lemma 2.3, we obtain for all y € J
[(D(x,y)— D(x,
“exp(l( (x, ) ; x yJ)))G(x,y) < Cg := max(sup |G|, sup |05 G]).
Co(I)

Using Holder’s inequality in (3-5), we obtain

Coll f 2,y

vy (J)

Eslr = 1 Fsllesny < f ) dpy () <

(J)

and (3-10) follows by integration in x, where we put Cyp := Cé ux (X).
Now, arguing by induction on H(J) with (3-10) as the base case and (3-9) as the inductive step, we
obtain for all J € Vy with Kg < H(J) < K — K,

[valF;
C0(1—81)K Ko—H(J) L2(J,uy)

IEs |3 <
L2 py (J)
In particular, for all J € Vy with H(J) = Ky, we have by (3-6)
2
By f)|? 2o 720,100
— =|IFs|7 <|Es|} < Ch™*0 ————==r,
H 1y (D) | 2cx L2(X,ux) — L2(X,ux) — wy (J)

where Cq := Co(1 — 81)_2K0. Using the identity

py () Bp(lyf)
py () py(J)

Buf =puy(¥) Y.
JeVy
H(J)=Ky

and (2-15), we estimate
185 f 12205 ey < CLrer DR f oy
and (3-4) follows with C := Cg (1 —¢&1) %0 /ux (X )y (Y). O

3B. The inductive step. In this section we prove Lemma 3.2. Let J € Vy satisfy Ko < H(J) < K —Kp
and Ji, ..., Jp be the children of J. It suffices to show that for all / € Vx with H(I)+ H(J) =K —1
we have

2 MY(Jb) 2
”EJ”LZ(I,MX) = (1 1) Z (J) Jb“Lz(I,MX)' (3-11)

Indeed, summing (3-11) over I, we obtain (3-9).
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Fix I e Vx with H(I)+ H(J) = K—1andlet Iy, ..., I4 be the children of /. Define
_ ux(Ua) __ ry(Jp)
a -— ) qb — .
px (1) py (J)
Note that p,,qp >0and p1+---+pa=q1+---+qgp =1.
The functions Fy and F, are related by the following formula:

B
: O(x, yg,) = P(x. y7)
Fr=Y qpexp(i¥p)Fj,. Wp(x):= U - . (3-12)
b=1
That is, Fy is a convex combination of Fy,, ..., Fj, multiplied by the phase factors exp(i V). At the

end of this subsection we exploit cancellation between these phase factors to show (3-11). However there
are several preparatory steps necessary. Before we proceed with the proof, we show the version of (3-11)
with no improvement:

Lemma 3.3. We have 5

WESZ 2y < D dIER 17201000 (3-13)
b=1

Proof. By (2-2), (3-1), and (3-7), we have for all a, b
B01al 17 _

46|14|-sup |¥y | < ? <1 (3-14)
1

Moreover, by (2-2) and (3-2) we have |I,4] < %|I |. Applying Lemma 2.3, we obtain

|l exp(iWp) Fypllc, 1) < I1F1,llcy -
By (3-12) and (2-15) we then have

B 2 B
IFS 12,0 < (Z qanJ,,nce(,)) < alFa 2, (3-15)
b=1 b=1

By (3-8), we have for all a, b

Eslr, = 1Frlleptn)s  Eaplt = I1Fs, llcory- (3-16)
Now, summing both sides of (3-15) over a with weights ux (/;), we obtain (3-13). O

The rest of this section is dedicated to the proof of (3-11), studying the situations in which the
bound (3-13) is almost sharp and ultimately reaching a contradiction. The argument is similar in spirit to
Lemma 1.2. In fact we can view Lemma 1.2 as the special degenerate case when A = B =2, p, =qp = %,
the intervals I, are replaced by points x,, Fj, = fj are constants, ug = Fj(x4), and wgp = Wp(x4).
The general case is more technically complicated. In particular we use Lemma 2.7 to deal with general
convex combinations. We also use §-regularity in many places, for instance to show that the coefficients
Pa,qp are bounded away from zero and to get the phase factor cancellations in (3-30) at the end of the
proof. The reading of the argument below may be simplified by making the illegal choice &1 := 0.
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We henceforth assume that (3-11) does not hold. Put
B

R:=Y " apl Fs,l3,) (3-17)
b=1
By (3-16), the failure of (3-11) can be rewritten as
A

> pallFrlg, g, > (1—e)R. (3-18)

a=1
We note for future use that p,, gp are bounded below by (2-4):

L= L=

——,  {min :=Mingp > .
! /
Cr b Cr

(3-19)

Pmin 1= l’l’}zil’l Pa =
We first deduce from (3-17) and the smallness of &1 an upper bound on each | Fy, ||¢c,(r) in terms of
the averaged quantity R:

Lemma 3.4. We have for all b,
1F s, llcocry < 2VR. (3-20)

Proof. The first inequality in (3-15) together with (3-18) implies

B 2 A
(S aslFnlesn) =2 pal sl = G —enk (321)
b=1 a=1
By (3-3) and (3-19) we have gmin > 2,/e1. Applying (2-17) to fp := || Fy, llce(,, With (3-17) and (3-21),
we obtain (3-20). O

We next obtain a version of (3-18) which gives a lower bound on the size of Fj, rather than on the
norm || Fyllc,(z,):

Lemma 3.5. There exist xq € 14, a=1,..., A, such that

A
> PalFr(xa)> > (1-2e1)R. (3-22)

a=1
Proof. By Lemma 2.3 and (3-14), we have
01, 'S}JP [(exp(iWp) Fy,) | < 21 Fs,llcor)-

It follows by (3-12) and the triangle inequality that for all a,

B
1
1F 5Ny < max(slup il 23 abll ||c9(1))- (3-23)
a b=1
By (3-15) we have
sup |Fr|> < | FslIZ, ) < R- (3-24)

Ia
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Therefore by (3-23) and the second inequality in (3-15)

I1F713, 1, = 3(R +sup ).

Summing this inequality over a with weights p,, we see that (3-18) implies
A
> pasup|Fy* > (1-2eD)R.

a=1 La

which gives (3-22). O
Now, choose x, as in Lemma 3.5 and put

Fab = F_]b (xa) S (C, Wap = ‘Ifb(xa) cR.

Note that by (3-12)
B

Fr(xa) =Y qpexp(iwap) Fap.
b=1

Using (2-15) for fp = exp(iwgp) F,p and (3-22), we obtain

. 2
> Paq|Fapl* > (1=2e)R+ Y paquqp |exp(i(@ap — ap)) Fap — Fapr|”- (3-25)
a,b aybab/
b<b’
From the definition (3-17) of R, we have for all a
B
> ablFapl” < R. (3-26)

b=1

Therefore, the left-hand side of (3-25) is bounded above by R. Using (3-19), we then get for all a, b, b’
the following approximate equality featuring the phase terms wgp:

2€1R
< 2
pminqmin
<2(CR)2 L' \/e1R. (3-27)

Using the smallness of &1, we obtain from here a lower bound on | Fp|:

‘exp(i (Wab — Wap')) Fap — Fapy

Lemma 3.6. For all a,b we have
|Fup| > 1V/R. (3-28)

Proof. By (3-3) and (3-19), we have pmin > 4¢1. Applying Lemma 2.8 to oy = ) qp|Fap|* and
using (3-25) and (3-26), we obtain for all a

B
> alFapl* = AR (3-29)
b=1
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We now argue similarly to the proof of (2-17). Fix a and let Fy min = ming | Fyp|, Famax = maxp |Fgpl.
By (3-29) we have Fy max > +/R/2. On the other hand the difference Fj max — Fy min is bounded above
by (3-27). By (3-3) we then have

Famin > \/AR—2(CR)?LSH" \/e1R > 1 VR. O

We next estimate the discrepancy between the values Fj for fixed b and different a, using the fact
that we control the norm || Fy, ||¢, (7) and thus the derivative of F, :

Lemma 3.7. Foralla,a’,b we have

2«/§|xa — Xg/| - 2VR
0|1] -0

| Fap — Farp| < LAD | xp —xg.

Proof. This follows immediately by combining Lemma 2.4, Lemma 3.4, and (2-2). O

Armed with the bounds obtained above, we are now ready to reach a contradiction and finish the proof
of Lemma 3.2, using the discrepancy of the phase shifts w,; and the lower bound on |8)2€y<I>| from (3-1).
Using part (3) of Lemma 2.1 and (3-2), choose a, a’, b, b’ such that
2
LC L3 <LHD |x, —xp| <2073,
_2’
1CpP LT3 < LDy, —yy| <2075,
Recall that x4 € I, is chosen in Lemma 3.5 and yj, := yy, is the center of J,. By Lemma 2.5, we have

for some (X,y) el x J,

(Xa —xa) (Vb — Ypr)
h

By (3-1) and (3-2) and since h = L=X, H(I)+ H(J) = K — 1, we have

. 2 &% o
T = Wgp + Wg'by — Wa'h — Wgp) = axyq)(x7 ).

2

/L_

—2_
3§

Cr

.
Wi
Wl

<|t|<8L73 <m.

00| =

Therefore, by Lemma 2.6 the phase factor e’ is bounded away from 1, which combined with (3-28)
gives a lower bound on the discrepancy:

<M

—2_
5 8

. R C
|Fab|'|€”—1|2|r|;/_2 Rgn L75VR. (3-30)

On the other hand we can estimate the same discrepancy from above by (3-27), Lemma 3.7, and the
triangle inequality:

|Fap|-1e'™ 1] = |e! @ar™0ar) Fypp —e! @arv=0ar) |
=< |ei(wab_wab,)Fab_Fab’|+ |Fab’_Fa’b’|+ |ei(wa/b_wa/b/)Fa’b_Fa’b’|+ |Fab_Fa’b|
< 4(CR2LSHY Je R+807'L73VR.
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Comparing this with (3-30) and dividing by +/R, we obtain

—2_
8

Cgr
8

This gives a contradiction with the following consequences of (3-2) and (3-3):

M)

L75 < 4(CR)ALP*Y fer +8071L73.

—2_
s

T A I M
167

—2_
]

Cg
167

EdM)
SN

W=
W=

L3,

. 4(CRALSTY ey <

3C. Proof of Theorem 1. We now show how to reduce Theorem 1 to Proposition 3.1. The idea is to split
G into pieces using a partition of unity. On each piece, by appropriate rescaling we keep the regularity
constant Cg and reduce to the case (3-1) and & = L™K for some fixed L satisfying (3-2) and some integer
K > 0.

To be more precise, let (X, ux), (Y, ny), 8, &', Iy, Jo, ®, G satisfy the hypotheses of Theorem 1.
Using a partition of unity, we write G as a finite sum

G=> Gy GyeC'(loxJo:C), supp Gy C Iy x J, (3-31)
{

where I, C Iy, Jy C Jo are intervals such that for some m = m({) € Z,
2" <197, ® <2™F! on Iy x Jg.

It then suffices to show (1-4), where G is replaced by one of the functions G,. By changing ® outside of
the support of G (which does not change the operator Bj), we then reduce to the case when

2" <02, ® <2™*! on Ipx Jo (3-32)

for some m € Z.
We next rescale By, to an operator B j satisfying the hypotheses of Proposition 3.1. Fix the smallest
L € Z satisfying (3-2). Choose K € Z and o € [1, +/L) such that

. hi=L7K (3-33)

Put for all intervals 1, J

<0

oX C Iy:=ol, ugol):= UguX(I),

=~

oY C Jo:=0alo, py(0J) = US/My(J).

Then (X, M ) is 8-regular, and (Y .ty ) is 8'-regular, up to scale o'k with regularity constant Cg. Consider
the unitary operators

Ux : L*(X.ux) —» L2(X.ug). Ux f(H) =072 f(0™'5),
Uy : L2(Y,py) — L2(F ). Uy f(F) =0"% f(o™' ).
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Then the operator Efz = UXBhUgl CL2(Y, ny) — L2(X, i ) has the form (1-3):

5o B )\ & 2 o pn _
Bt )= [Lexo( "2 )60 1) dug ()
where
B(t,5) =200 %,071F), G(EH)=0"2G0 E,075).
By (3-32) the function ® satisfies (3-1). Fix smallest Ko € Ng such that oh < LKo=K that is,

LKo> 2"
~ 0o
Without loss of generality, we may assume that % is small enough depending on L, m so that K > 2Kj.

Then Proposition 3.1 applies to B j and gives

||Bh||L2(Y,uy)—>L2(X,uX) = ||Eﬁ”L2(?,u)~,)—>L2(f,ug) = C};SO = C(Z_mL)sohao

for ¢ defined in (1-5) and some constant C depending only on 8,8, Cg, Iy, Jo, ®, G. This finishes the
proof of Theorem 1.

4. Application: spectral gap for hyperbolic surfaces

We now discuss applications of Theorem 1 to spectral gaps. We start with the case of hyperbolic surfaces,
referring the reader to [Borthwick 2016; Dyatlov and Zahl 2016] for the terminology used here.

Let M = I'\H? be a convex cocompact hyperbolic surface, Ar C S! be its limit set, § € [0, 1) be the
dimension of Ar, and u be the Patterson—Sullivan measure, which is a probability measure supported
on Ar; see for instance [Borthwick 2016, Section 14.1]. Since Ar is closed and is not equal to the
entire S', we may cut the circle S! to turn it into an interval and treat A as a compact subset of R.
Then (Ar, p) is §-regular up to scale 0 with some constant Cg; see for instance [Borthwick 2016,
Lemma 14.13]. The regularity constant Cr depends continuously on the surface, as explained in the case
of three-funnel surfaces in [Dyatlov and Zahl 2016, Proposition 7.7].

The main result of this section is the following essential spectral gap for M. We formulate it here in
terms of the scattering resolvent of the Laplacian. Another formulation is in terms of a zero-free region
for the Selberg zeta function past the first pole; see for instance [Dyatlov and Zahl 2016]. See below for a
discussion of previous work on spectral gaps.

Theorem 2. Consider the meromorphic scattering resolvent

2 2
RO = (“Ay — 1 -2yt JE D = L7500, dmA> 0,
Lcomp(M) - L1OC(M), ImA <0.

Assume that 0 < § < 1. Then M has an essential spectral gap of size

B=1—56+13CR) 5w 4-1)
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that is, R(X) has only finitely many poles in {Im A > —B} and it satisfies the cutoff estimates for each
V¥ € C§°(M), & > 0 and some constant Cy depending on &

IRV |22 < C(, €)|A| 71 72min@mD+e 1 ) € [-B, 1], |[Re A| = Co.

Proof. We use the strategy of [Dyatlov and Zahl 2016]. By Theorem 3 of that paper, it suffices to show
the following fractal uncertainty principle: for each p € (0, 1),

1 2N — 160
Bo:=5—38+(150Cg) 50-9,
and each cutoff function y € C*®°(S! x S!) supported away from the diagonal, there exists a constant C
depending on M, y, p such that for all & € (0, 1)
ILar 42 Brlaraollzsn—r2sty < ChP7207P), (4-2)

where Ar(h?) C S! is the h” neighborhood of A and the operator B j, is defined by (here |x — y| is
the Euclidean distance between x, y € S! C R?)

Benf @)= Qa4 [ 1x— i xe,) ) dy.

To show (4-2), we first note that by Lemma 2.2, (Y, juy) is §-regular up to scale s with constant 30C 2,
where Y = Ar(h) and py is h®~! times the restriction of the Lebesgue measure to Y. We lift y(x, y) to
a compactly supported function on R? (splitting it into pieces using a partition of unity) and write

Bynlarmy f(x) = Qr) 2h3 8B, f(x),

where Bj, has the form (1-3) with G(x,y) = x(x,y) and (with |x — y| still denoting the Euclidean
distance between x, y € Sl)
O(x, y) =2log|x —y|.

The function ® is smooth and satisfies the condition 3)2”,@ # 0 on the open set S! x S\ {x =y} which
contains the support of G; see for instance [Bourgain and Dyatlov 2016, Section 4.3]. Applying Theorem 1
with (X, uy) := (Y, uy), we obtain

11ar) BynlarmllLzsy—»r2st) < ChPo.

Similarly we have

LA )+t Byplary+slr2stysr2sty < ChPO, 15 e[-1,1],

where X + ¢ is the result of rotating X C S! by angle ¢. Covering A (h”) with at most 10427~ rotations
of the set Ar(h), see for instance the proof of [Bourgain and Dyatlov 2016, Proposition 4.2], and using
triangle inequality, we obtain (4-2), finishing the proof. O

We now briefly discuss previous results on spectral gaps for hyperbolic surfaces:

» The works [Patterson 1976; Sullivan 1979] imply that R(A) has no poles with ImA > § — % On
the other hand, the fact that R(A) is the L? resolvent of the Laplacian in {Im A > 0} shows that it has
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only has finitely many poles in this region. Together these two results give the essential spectral gap
B = max(O, % — 8). Thus Theorem 2 gives no new results when § is much larger than %

e Using the method developed by Dolgopyat [1998], Naud [2005] showed an essential spectral gap of
size B > % — & when § > 0. Oh and Winter [2016] showed that the size of the gap is uniformly controlled
for towers of congruence covers in the arithmetic case.

» Dyatlov and Zahl [2016] introduced the fractal-uncertainty-principle approach to spectral gaps and used
it together with tools from additive combinatorics to give an estimate of the size of the gap in terms of
CR in the case when § is very close to %

* Bourgain and Dyatlov [2016] showed that each convex cocompact hyperbolic surface has an essential
spectral gap of some size 8 = B(§, Cr) > 0. Their result is new in the case § > % and is thus complementary
to the results mentioned above, as well as to Theorem 2.

More generally, spectral gaps have been studied for noncompact manifolds with hyperbolic trapped sets.
(See for instance [Nonnenmacher 2011, Section 2.1] for a definition.) In this setting the Patterson—Sullivan
gap % — § generalizes to the pressure gap — P (%) which has been established by Ikawa [1988], Gaspard
and Rice [1989], and Nonnenmacher and Zworski [2009]. An improved gap § > —P (%) has been proved
in several cases; see in particular [Petkov and Stoyanov 2010; Stoyanov 2011; 2012]. We refer the reader
to [Nonnenmacher 2011] for an overview of results on spectral gaps for general hyperbolic trapped sets.

5. Application: spectral gap for open quantum maps

In this section, we discuss applications of the fractal uncertainty principle to the spectral properties of open
quantum maps. Following the notation in [Dyatlov and Jin 2017] we consider an open quantum baker’s
map By determined by a triple (M, A, x), where M € N is called the base, A C Zp; ={0,1,..., M —1}
is called the alphabet, and y € C§*((0,1); [0, 1]) is a cutoff function. The map By is a sequence of
operators By : 4%, — (%, {%, = (*(Zy), defined for every positive N € MZ by

XN/M FN/M XN/M
By =Fn Iwe (5-1)
XN/M FN/M XN/M

wijl

where Fy is the unitary Fourier transform given by the N x N matrix (1/+/N )(e_zT) it XN/M 18
the multiplication operator on K%, M discretizing y, and I 4,7 is the diagonal matrix with £-th diagonal
entry equal to 1 if [£/(N/M)]| € A and 0 otherwise.

An important difference from [Dyatlov and Jin 2017] is that in the present paper we allow N to be any
multiple of M, while they required that N be a power of M. To measure the size of N, we let k be the
unique integer such that M¥ < N < M¥*1 je., k = |log N/log M |. Denote by § the dimension of the
Cantor set corresponding to M and A, given by

5= log | A|
C o logM
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The main result of this section is the following spectral gap, which was previously established in [Dyatlov
and Jin 2017, Theorem 1] for the case when N is a power of M:

Theorem 3. Assume that 0 < § < 1; that is, 1 < |A| < M. Then there exists

B = B(M, A) > max(0, 1 —§) (5-2)
such that, with Sp(By) C {A € C: |A| < 1} denoting the spectrum of By,
limsup max{|A|: A € Sp(By)} <M P (5-3)
N—>oco, NeM7Z

The main component of the proof is a fractal uncertainty principle. For the case N = M*, the following
version of it was used in [Dyatlov and Jin 2017]:

I2c, Fvle gz gz < CN7P, (5-4)
where Cy, is the discrete Cantor set given by
k—1 .
Crk :={ZajM]:a0,...,ak_1€A} CZn. (5-5)
=0

For general N € MZ N [M*, M¥**1), we define a similar discrete Cantor set in Zy by
. JN
Ck(N):=1{bj(N):jeC}CZn, bj(N):= k| (5-6)
In fact, in our argument we only need b; (N) to be some integer in [[N/M*, (j + 1)N/M¥).
The uncertainty principle then takes the following form:
Theorem 4. Assume that 0 < § < 1. Then there exists
B = B(M, A) > max(0, 1 — ) (5-7)
such that for some constant C and all N,
IXer i FNleeanlle e, = CNP. (5-8)

In Section 5A below, we show that Theorem 4 implies Theorem 3. We prove Theorem 4 in Sections 5C
and 5D using Ahlfors—David regularity of the Cantor set, which is verified in Section 5B.

S5A. Fractal uncertainty principle implies spectral gap. We first show that Theorem 4 implies Theorem 3.
The argument is essentially the same as in [Dyatlov and Jin 2017, Section 2.3], relying on the following
generalization of Proposition 2.5 from that paper:

Proposition 5.1 (localization of eigenstates). Fix v > 0, p € (0, 1), and assume that for some k € N,
NeMZnN [Mk,Mk‘H), A eC, uel?, we have

Byu=Au, [A|>M"".
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Define
Xp=| J{e(N)+m:meZ |m|<(M+2N'"P} CZy.
Then
lullgz, < M| Pk 11x,ull2, + ONT)lullg . (5-9)
lu—F1x, Fnull = ON ") |ullg . (5-10)

where the constants in O(N ~°°) depend only on v, p, y.

Proof. Following [Dyatlov and Jin 2017, (2.7)], let ® = ®js 4 be the expanding map defined by

1 1
q);l_l i,i —(0,1), ®(x)=Mx—a, x€ i,i . (5-11)
M M M M
acA
Put

k:=[pkle{l,....k}. (5-12)
With d( -, -) denoting the distance function on the circle as in [Dyatlov and Jin 2017, Section 2.1], define
X, = {x €[0.1]: d(x, ®F([0, 1)) < N},

Then (5-9), (5-10) follow from the long time Egorov theorem [Dyatlov and Jin 2017, Proposition 2.4]
(whose proof never used that N is a power of M) similarly to Proposition 2.5 of the same paper, as long
as we show the following analog of [Dyatlov and Jin 2017, (2.30)]:

¢
(e{0...N-1}. ek = (leX, (5-13)

To see (5-13), note that (with the intervals considered in R/Z)

- . k—k k—k
_i j—M j+M
oFpo.e U (L)
J€Ck

Assume that £ € {0,..., N — 1} and £/N € X,,. Then there exists j € Cx such that

e -

dl =, 2 V<N P+ MF*<M+1)N".
(N Mk)_ " =M+

It follows that

£ bj(N) -
dl = — ) <M +2N~*
(£.24) o
and thus £ € X, as required. O

Now, we assume that Theorem 4 holds and prove Theorem 3. Using the triangle inequality as in the
proof of [Dyatlov and Jin 2017, Proposition 2.6], we obtain

11, F1x, 2 2, < @M + 5> N2T2 L iy Fv Lol 3,
< CN2U=P=B, (5-14)

Here C denotes a constant independent of N.
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Assume that A € C is an eigenvalue of By such that |[A| > M8 and u € E%\, is a normalized
eigenfunction of By with eigenvalue A. By (5-9), (5-10), and (5-14)
—ok —
1= llullg, = MPIAI™"F | Ly, ullz +ON~)
< MP 1A 7P¥)1x, P 1x, Fyull g, + O(N ™)
< CIA|PEN2A=P=B L o(N~). (5-15)

It follows that |A|°K < CN~F+2(-0) or equivalently

|)L| < C%kMz(lfg:)fB.
This implies

. B g 20=0=8
limsupmax{|A|: A € Sp(By)} <max{M ", M » }.

N—o0

Letting p — 1, we conclude the proof of Theorem 3.

5B. Regularity of discrete Cantor sets. Theorem 4 will be deduced from Theorem 1 and the results of
[Bourgain and Dyatlov 2016]. To apply these, we establish Ahlfors—David regularity of the Cantor set
Cr(N)yCZy ={0,..., N — 1} in the following discrete sense.

Definition 5.2. We say that X C Zy is §-regular with constant Cg if
e for each interval J of size |J| > 1, we have #(J N X) < Cg|J |, and
e for each interval J with 1 <|J| < N which is centered at a point in X, we have #(J N X) > CEI |7,
Definition 5.2 is related to Definition 1.1 as follows:
Lemma 5.3. Let X C Zy. Define X := N~1X C [0, 1] which supports the measure
1g(A) =N #4XNnA4), ACR. (5-16)
Then X is §-regular with constant Cg in the sense of Definition 5.2 if and only if (f , i) is 8-regular up
to scale N~ with constant Cg in the sense of Definition 1.1.
Proof. This follows directly from the two definitions. O
We first establish the regularity of the discrete Cantor set Cj defined in (5-5):
Lemma 5.4. The set Cy C Zyk is 5-regular with constant Cr = 2M2,
Proof. We notice that for all integers k” € [0,k] and j' € Z
JAK = M8¥ 7 e Crypo,
o J'# Cher

Let J be an interval in R, with 1 < |J| < N = M¥. Choose an integer k' € [0,k — 1] such that
MK < |J| < M¥*1, Then there exists some j’ € Z such that

#Cr N MR G+ 1HMF)) (5-17)

J C [ MFHL (G 4 2)MF+,
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Therefore by (5-17)
#(CNJ) <2M8E+D <opd1 718 < Cr|JI )P

On the other hand, if |J| > N then
#(CNJ) <#(Cx)=N®<|J|°.

This gives the required upper bound on #(Cy N J).
Now, assume that 1 < |J| < N and J is centered at some j € Cr. Choose k' as before. If k¥’ = 0 then

#CrNJ)=1=>MJ)P5 =gl

We henceforth assume that 1 <k’ <k —1. Let j’ € Cx_gs+1 be the unique element such that j’M*'~1 <
j < (' +1)M¥ 1 Since M > 2, we have |J| > M¥ > 2M*'~1 and thus

G/ME LG+ DME T [ - MF L+ MR
Therefore by (5-17)
#(C N J) = MOE=D > =281 718 > et g B,
This gives the required lower bound on #(Cg N J), finishing the proof. O
We now establish regularity of the dilated Cantor set C (N ):

Proposition 5.5. Assume that M* < N < M*t! and let Ct (N) C Zy be given by (5-6). Then Cx(N) is
8-regular with constant Cg = 8M 38,

Proof. For any interval J, we have
M* M*
#(C(NYNJ) =#{j €Cr:bj(N) € J} =#{j €Cr: Hbi(N) € TJ}.
By our choice of b;(N), we have (Mk/N)bj(N) € [j,j +1). Therefore

#(ck N MTkJ) —1<#Cu(N)N J) 5#(ck N MTkJ) 1.

We apply Lemma 5.4 to see that for any interval J with |J| > 1
#Ce(NYNJT) <2M2 1718 +1 <3M?8 718 < Cr|J )%

Now, assume that J is an interval with 85 M3 < |J| £ N centered at b; (N) for some j € Cx. Then
(M*/N)J contains the interval of size ﬁl] | centered at j. Therefore, by Lemma 5.4

#(C(N)NJ) > L (1Y 1> 171" >Cz'J)°
k =oM% \2M = gm3s — R

Finally, if J is an interval with 1 < |J| < 85 M3 centered at a point in C (N), then

#C(N)NJ)=1>CRJI O
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5C. Fractal uncertainty principle for § < % The proof of Theorem 4 in the case § < % relies on the
following corollary of Theorem 1:

Proposition 5.6. Let X, Y C Zy be §-regular with constant CRr and 0 < § < 1. Then
—(1_
”lX‘FNlY”Z%v_)@V <CN (2 8+€0), (5-18)

where C only depends on §, Cr and
g0 = (5CR) ™ 515 (5-19)
Proof Put h:= N~1, X = hX, Y = hY, and define the measures Ui, iy by (5-16). By Lemma 5.3,
(X, M) and (v, Wy ) are §-regular up to scale 4 with constant Cg. Consider the operator
By: L'V, ug) — L¥(X . ng)
defined by

511 = [[exo(~T5) 0 g )

and note that it has the form (1-3) with ®(x, y) = —2nxxy, G = 1. By Theorem 1

”Bh ”Lz(?,ﬂy)—)Lz()‘stg) = Ch®o.

Comparing the formula
Bhf(ﬁ) _N Zexp(— g )f(ﬁ . jex.
leY
with the definition of the discrete Fourier transform Fp, we see that

_ Ar8-3 ~ ~
”lX}—NlY”(%V_)Z?V =N 2||Bh||L2(Y,u7)—>L2(X,/L§)’
which finishes the proof. O
Combining Propositions 5.5 and 5.6, we get (5-8) for

1 35— 160
B=1-5+0M>*) 505 (5-20)

which finishes the proof of Theorem 4 for § < %

5D. Fractal uncertainty principle for § > % For § > %, Theorem 1 does not in general give an improve-
ment over the trivial gap f = 0. Instead, we shall use the following reformulation of [Bourgain and

Dyatlov 2016, Theorem 4]:

Proposition 5.7. Let 0 < § <1, Cgr > 1, N > 1 and assume that f, Y C [—1,1] and (f,ui) and
(7, Wy ) are §-regular up to scale N~ with constant Cg in the sense of Definition 1.1, for some finite
measures [Lg, Ly supported on XY

Then there exist Bo > 0, Co depending only on §, Cg such that for all f € L*(R),

supphtf CN-¥ = | fll2c8) < CoN Pl fll2m).- (5-21)
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Here f denotes the Fourier transform of f:
hif(§) =Ff(€) = Ae_z”ixsf(X) dx. (5-22)
Proposition 5.7 implies the following discrete fractal uncertainty principle:
Proposition 5.8. Let X, Y C Zy be 8-regular with constant Cr and 0 < § < 1. Then
Ilx Fn1yllez, 3, < CN7E, (5-23)
where C, B > 0 only depend on §, Cp.

Proof. Put h:= N71,
X :=hX +[=h,h], Y:=hY +[-h,h],

and define the measures (5, iy on XY by (2-6). By Lemmas 5.3 and 2.2, (X, u ) and (¥, Wy ) are
§-regular up to scale & with constant 30C1%. Applying Proposition 5.7, we obtain for some constants
Bo > 0, Co depending only on §, Cg and all f € L?(R)

supphtf CN-Y = [l 2% < CoN Pl fllr2@m). (5-24)
To pass from (5-24) to (5-23), fix a cutoff function y such that for some constant ¢ > 0

1eCE((=3:2)): lxllza =1, inf 177"yl =

This is possible since for any y € C5°(R) which is not identically 0, F ~1y extends to an entire function
and thus has no zeros on {Im z = s} for all but countably many choices of s € R. Choosing such s we see
that 7~ (e~ y(£)) has no real zeros.

Now, take arbitrary u € Z%V. Consider the function f € L?(R) defined by

FE =Y u)yE-0.

leY

Then suppf C N-Y and I/ 2@ < ||u||z%v, so by (5-24)

1/ L2y < CoNPllulla . (5-25)
On the other hand, for all j € Zy, we have for all j € X
1
N

Consider the nonoverlapping collection of intervals

7(4) =z eo( %) 5-26)

L=l L 2o 1lcg jex
J N 2NN ' 2N
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Using that (| /'|2)’ = 2Re(f f), we have

2
C
2 ¢ s
sc/h £l dx+N/Ij @)1 )l d,

1 J
*1 . 2<_ e
| Fylyu(j)l _CZN‘f(N)

where C denotes some constant depending only on §, Cg, y. Summing over j € X and using the
Cauchy—Schwarz inequality, we obtain

C
||1XJE}§}1W||§3V =< C“f”zz(j(") TALAUES o% £ 2 y-
Since suppf C [—N, N], we have ||f’||L2(R) <1ON|[flir2w) =< 10N||u||13%V and thus by (5-25)
||1X]'—;\<]1Y”||§%V < CN_‘%IIMII?%V,

which gives (5-23) with 8 = 1 Bo. O

Combining Propositions 5.5 and 5.8, we obtain (5-8) for % < § < 1, finishing the proof of Theorem 4.
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DINI AND SCHAUDER ESTIMATES FOR NONLOCAL FULLY NONLINEAR
PARABOLIC EQUATIONS WITH DRIFTS

HONGIIE DONG, TIANLING JIN AND HONG ZHANG

We obtain Dini- and Schauder-type estimates for concave fully nonlinear nonlocal parabolic equations
of order o € (0,2) with rough and nonsymmetric kernels and drift terms. We also study such linear
equations with only measurable coefficients in the time variable, and obtain Dini-type estimates in the
spacial variable. This is a continuation of work by the authors Dong and Zhang.

1. Introduction and main results

The paper is a continuation of [Dong and Zhang 2016a; 2016b] by the first and last authors, where
they obtained Schauder-type estimates for concave fully nonlinear nonlocal parabolic equations and
Dini-type estimates for concave fully nonlinear nonlocal elliptic equations. Here, we consider concave
fully nonlinear nonlocal parabolic equations with Dini continuous coefficients, drifts and nonhomogeneous
terms, and establish a C? estimate under these assumptions.

The study of second-order equations with Dini continuous coefficients and data dates back to at least
1970s, when Burch [1978] first considered divergence-type linear elliptic equations with Dini continuous
coefficients and data, and estimated the modulus of continuity of the derivatives of solutions. Later work
for second-order linear or concave fully nonlinear elliptic and parabolic equations with Dini data includes,
for example, [Sperner 1981; Lieberman 1987; Safonov 1988; Kovats 1997; Bao 2002; Duzaar and Gastel
2002; Wang 2006; Maz’ya and McOwen 2011; Li 2017], and many others.

The regularity theory for nonlocal elliptic and parabolic equations has been developed extensively in
recent years. For example, C% estimates, C 1»* estimates, an Evans—Krylov-type theorem, and Schauder
estimates were established in the past decade. See, for instance, [Caffarelli and Silvestre 2009; 2011;
Dong and Kim 2012; 2013; Kim and Lee 2013; Lara and D4vila 2014; Mikulevicius and Pragarauskas
2014; Chang-Lara and Kriventsov 2017; Jin and Xiong 2015; 2016; Serra 2015; Mou 2016; Imbert et al.
2016]. In particular, Mou [2016] investigated a class of concave fully nonlinear nonlocal elliptic equations
with smooth symmetric kernels, and obtained the C? estimate under a slightly stronger assumption
than the usual Dini continuity on the coefficients and data. He implemented a recursive Evans—Krylov
theorem, which was first studied by Jin and Xiong [2016], as well as a perturbation-type argument.
By using a novel perturbation-type argument, the first and last authors proved the C° estimate for

H. Dong and H. Zhang were partially supported by the NSF under agreements DMS-1056737 and DMS-1600593. T. Jin was
partially supported by Hong Kong RGC grant ECS 26300716 and HKUST initiation grant IGN16SC04.

MSC2010: primary 35B45, 35K55, 35R09; secondary 35B65, 60J75.

Keywords: nonlocal fully nonlinear parabolic equations, Dini- and Schauder-type estimates, critical drift terms.
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concave fully nonlinear elliptic equations in [Dong and Zhang 2016a], which relaxed the regularity
assumption to simply Dini continuity and also removed the symmetry and smoothness assumptions on
the kernels.

In this paper, we extend the results in [Dong and Zhang 2016a] from elliptic equations to parabolic
equations with drifts; that is, we study fully nonlinear nonlocal parabolic equations in the form

d;u = inf (Lgu + bgDu + , 1-1
t 2 (Lp B /8) (1-1)
where A is an index set and for each 8 € A,

Lﬁu:/ 5u(t,X,y)K,B(f,va’)dyv
R4

u(t,x+y)—u(t, x) foro € (0, 1),
Su(t,x,y)=u(t,x+y)—u(t,x)—y-Du(t,x)xp, foro=1,
u(t,x+y)—u(t,x)—y-Du(t, x) foro € (1,2),

and
Kp(t.x.y) = ap(t.x, y)|y| 7.

This type of nonlocal operator was first investigated by Komatsu [1984], Mikulevicius and Pragarauskas
[1992; 2014], and later by Dong and Kim [2012; 2013], and Schwab and Silvestre [2016].
We assume
2—o)A<ag(-.-.-)<=(2—0)A forall B € A,

for some ellipticity constants 0 < A < A, and is merely measurable with respect to the y-variable. When
o = 1, we additionally assume

/ yKg(t,x,y)dsy =0 (1-2)
s,

for any r > 0, where S, is the sphere of radius r centered at the origin.
We also assume bg =0 when 0 < 1 and bg = b(t, x) is independent of 8 when o = 1.
We say that a function f is Dini continuous if its modulus of continuity wy is a Dini function, i.e.,

1
/ a)f(r) dr < oo.
0

r

We need the Dini continuity assumptions on the coefficients of (1-1):

sup / lag(t,x,y)—ag(t’.x', y)|dy < Ar?wg(max{|x —x'|, |t —t’|$}) for all r > 0,
BeA B>, \B,

1
sup || fallLoo(r) <00, sup | fp(t, x) — fp(t'. X)) < wp (max{|x —x'|, [t =17 }),
BeA BeA (1-3)

1
sup [|bgllLee(01) = No»  sup b (t, x) —bg(t, X')| < wp(max{|x —x'|, [t — |7 }),
BeA BeA

where Ny > 0, and wg, wp, wy are all Dini functions.
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In Theorem 1.1 below, w, denotes the modulus of continuity of # in (—1, 0) x IRd; that is,

lu(t, x) —u(t’,x")| < wy(max{|x — x|, |t —z’|§}) for all (z, x), (1,x") € (—1,0) x R?.

We also use the notation C 1"’JF(QI) to denote Ctl’ers(Ql) for some arbitrarily small ¢ > 0. This

condition is only needed for L gu to be well defined, and may be replaced by other weaker conditions.

Theorem 1.1. Let o €(0,2), 0 <A < A <00, and A be an index set. Assume for each f € A, K p satisfies
(1-2) when o = 1, and the Dini continuity assumption (1-3) holds for all (¢, x), (t',x") € Q1. Suppose
ue Cl’”Jr(Ql) is a solution of (1-1) in Qy and is Dini continuous in (—1,0) x R%. Then we have d;u is
uniformly continuous and the a priori estimate

(o,]
19:ul Log@1)2) + 13 0,,, < C D Q77 0u(2)) + 0u277) + 0 (277)), (1-4)
j=0

where C > 0 is a constant depending only on d, o, A, A, Ny, wp, and wg. Moreover, when o # 1, we
have

sup [u])(;;Qr(tO,xO) —0 asr—0
(t0,x0)€Q1/2

with a decay rate depending onlyon d, o, A, A, w,, wf, wy, No, and wp. When o = 1, Du is uniformly

continuous in Q1 with a modulus of continuity controlled by the quantities before.

This theorem improves Theorem 1.1 in [Dong and Zhang 2016a] in the following two ways. First,
(1-1) is parabolic and has drift terms. Second, the right-hand side of the estimate (1-4) depends only on
the seminorms of u and f, in particular, not on supge 4 || /81l Lo (01)-

Remark 1.2. When o € (1,2) in Theorem 1.1, by interpolation inequalities we have

oo
(Dl g, , = CUBUlL0r2 +l50,,,) S C YT 0u(2)) + 0u(277) + 0 (27)).

j=0

The same proof of Theorem 1.1 can be used to prove Schauder estimates for concave fully nonlinear
nonlocal parabolic equations with drifts. To this end, we need the Holder continuity assumptions on the
coefficients of (1-1):

sup / lag(t,x,y)—ag(t’.x', y)|dy < Ard max{|x —x'|", |t —¢/|o} forall r > 0,
ﬂEA BZr\BV

v
sup || fgllLoo(or) <00, sup | fp(t,x) — fp(t' x")| < Cp max{|x —x"|". |t —¢'| 7},
BeA BeA (1-5)

v
sup [|bgllLae(01) = No.  sup [bg(t, x) —bg(t', x")| < Cp max{|x —x'|%, [t — '},
BeA BeA

where Ny, Cr,Cp >0, and y € (0, 1).

Recall that we assume bg = 0 when o < 1, and bg = b(t, x) is independent of 8 when o = 1.
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Theorem 1.3. Leto € (0,2), 0 <A < A < 00, and A be an index set. There exists & depending only on
d, A, A and o (uniform as 0 — 27) such that the following holds. Let y € (0, &) such thato +y < 2
is not an integer. Assume for each B € A, Kg satisfies (1-2) when o = 1, and the Holder continuity
assumptions (1-5) hold for all (¢, x), (t', x') € Q1. Suppose u € C1T59+7 (0 )N C&Y((—1,0) x RY)
is a solution of (1-1) in Q1; then we have the a priori estimate

[u]l—l—%,o'—‘r-y;Ql/z = C”u”g,y;(—l’o)x[}@d + CCf, (1'6)
where C > 0 is a constant depending only on d, o, y, A, A, Ny, and Cp,.

The essential new part of Theorem 1.3 is for the case ¢ = 1. For 0 < 1, Theorem 1.3 is just Theorem 1.1
in [Dong and Zhang 2016b]. Even though the Holder continuity assumption appeared slightly differently,
the proof in [Dong and Zhang 2016b] can be carried out with minimal modifications. For o > 1, the drift
is a lower-order perturbation and the conclusion can be proved without assuming o 4+ y < 2 by using
Theorem 1.1 in [Dong and Zhang 2016b] and interpolation inequalities.

In the case of the linear equation

diu=Lu+bDu+ f, (1-7)
the estimate (1-6) holds for all y € (0,0). Again, we assume b = 0 when o < 1.

Theorem 1.4. Leto € (0,2), 0 <A <A <o00,and y € (0,0) such that o + y is not an integer. Assume
K satisfies (1-2) when o = 1, and the Hélder continuity assumptions (1-5) hold for all (¢, x), (¢, x") € Q1.
Suppose u € CH'%""H’(QI) N C%’V((—l, 0) x R?) is a solution of (1-7) in Q1 ; then we have the a priori
estimate

[li4+2,04y:01,, = Cllullz ys-1,0xre) + CCrs (1-8)
where C > 0 is a constant depending only on d, o,y, A, A, Ny, and Cp,.

It is natural to assume y < o in Theorem 1.4, since (1-5) will imply that f is independent of ¢ if
0 < o < y. In many applications, a will be independent of ¢ as well under the assumptions of (1-5) and
o < y. Then, we can always differentiate (1-7) in ¢, and obtain higher-order regularity in ¢ by applying
the result of Theorem 1.4 above.

We are also interested in the linear equation (1-7) when K, b, and f are Dini continuous in x but only
measurable in the time variable ¢, that is, they satisfy

/ la(t, x, y) —a(t,x", )| dy < Arwg(|x —x|) forall r >0,

By
[ f ooy <00, | f(t.x)— f(t.x")] S wp(Ix —x']), (1-9)
1610y < Now 16t x) —b(t,x")| < wp(|x —x']),

where No > 0, and w,, wp, wy are all Dini functions.

In Theorem 1.5 below, w, denotes the modulus of continuity of # in x uniform for all ¢; that is,

lu(t,x) —u(t,x")| < wu(|x —x'|) forall (¢,x),(t,x") € (—1,0) x RY.
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Theorem 1.5. Let o € (0,2), 0 < A < A < oo. Assume K satisfies (1-2) when o = 1, and the Dini
continuity assumption (1-9) holds for all (¢, x), (t,x") € Q1. Suppose u € clot (Q1) is a solution of
(1-7) in Q1 and is Dini continuous in x in (—1,0) x R%. Then we have the a priori estimate: for o € (0, 2),

o0
l0sllzei0r/2) + 50, < C D Q7 0u@)) + 0u277) +wp27)). (1-10)
j=0
where C > 0 is a constant depending only on d, o, A, A, Ny, wp, and wg. Moreover, when o # 1, we
have
sup  [ul3.0,(toxg) 0 asT—0
(t0,x0)€Q1/2 | '
with a decay rate depending onlyon d, o, A, A, w,, wf, oy, No, and wp. When o = 1, Du is uniformly
continuous in x in Q1 with a modulus of continuity controlled by the quantities before. Also, 0;u is
uniformly continuous in x in Q 1/, with a modulus of continuity controlled by d,o, A, A, wg, wf, Wy,
N()s Wp, and ||u||Loo

If K, b, and f in (1-7) are Holder continuous in x locally but only measurable in the time variable ¢,
that is, they satisfy

/ la(t, x, y) —a(t,x, y)|dy < Ar¢|x —x'|Y forallr >0,
BZr r

1/ Lowtony <000 |£(t.) = f(t.x)] < Cplx = x'P. (a-11)
10Laio < Now |6t x) = b(t.x")| < Cylx =],

where Ny, C,, Cp >0, and y € (0, 1),
then we have:

Theorem 1.6. Leto € (0,2), 0 <A <A <o0,and y € (0, 1) such that 0 + y is not an integer. Assume K
satisfies (1-2) when o = 1, and the Holder continuity assumptions (1-11) hold for all (¢, x), (t, x") € Q.
Suppose u € C19T7(Q) N CY((~1,0) x R4 is a solution of (1-7) in Q1; then we have the a priori
estimate

[Btu];ﬁ;Ql/z + [u]§+y,;Q1/z < C||u||;f;(_1’0)de) +CCy, (1-12)
where C > 0 is a constant depending only on d, o,y , A, A, Ny, and Cp,.

Note that here we assume y € (0, 1) for all o € (0, 2), since all the estimates only involve x. This
theorem improves Theorem 1.1 in [Jin and Xiong 2015], which does not include drifts and requires the
Holder continuity of @ and f in the time variable # as well. In the second-order case, similar results were
obtained a long time ago by Knerr [1980/81] and Lieberman [1992].

A few remarks are in order.

Remark 1.7. It is evident that Theorems 1.1, 1.3, 1.4, 1.5, and 1.6 hold for corresponding elliptic
equations as well.

Remark 1.8. Our proof does not tell whether the a priori estimates in Theorems 1.1 and 1.5 can be made
uniformly bounded as 0 — 27, even if we replace A by (2—0)A in both (1-5) and (1-9).
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The ideas of our proofs are in the spirit of the approach first developed in [Campanato 1966], which
has been used in [Dong and Zhang 2016a] for nonlocal fully nonlinear elliptic equations. A similar idea
was also used in the literature to derive Cordes—Nirenberg-type estimates; see, e.g., [Nirenberg 1954].
Here, we adapt the methods in [Dong and Zhang 2016a] from elliptic settings to parabolic settings, with
extra efforts to deal with the drift term especially when o = 1 and some simplification of the proofs.

The key idea is that instead of estimating the C? seminorm of the solution, we construct and bound
certain seminorms of the solution; see Lemma 2.1. When o < 1, we define such a seminorm as a series
of lower-order Holder seminorms of u. In order for the nonlocal operator to be well defined, the solution
needs to be smoother than C?. This motivates us to divide the integral domain into annuli, and use a
lower-order seminorm to estimate the integral in each annulus. The proof of the case when o > 1 is
more involved mainly due to the fact that the series of lower-order Holder seminorms of the solution
itself is no longer sufficient to estimate the C? norm. Therefore, we need to subtract a polynomial from
the solution in the construction of the seminorm. In some sense, the polynomial should be chosen to
minimize the series. It turns out that when o > 1, we can make use of the first-order Taylor’s expansion
of the mollification of the solution.

The organization of this paper is as follows. In the next section, we introduce some notation and
preliminary results that are necessary in the proofs of our main theorems. In Section 3, we show the Dini
estimates for nonlocal nonlinear parabolic equations in Theorem 1.1. In Section 4, we prove the Schauder
estimates for equations with a drift in Theorems 1.3 and 1.4. The last section is devoted to linear parabolic
equations with measurable coefficients in the time variable ¢z, where Theorems 1.5 and 1.6 are proved.

2. Preliminaries

We will use the following notation:

e For r > 0, we set Q,(tg, xo) = (to — % to] X Br(x¢) and Qr(zo,xo) = (to — 1%ty +1r°) X Br(x9),
where B, (xo) C R¥ is the ball of radius r centered at xo. We write Q, = O, (0, 0) for brevity.

e P; (or Py) is the set of first-order polynomials in # (or x), respectively.

e P, is the set of first-order polynomials in both ¢ and x.

e Fora,f >0,
e 8:0: (t0.x0) = [l ce8 (0, (1. x0))
[u]g;Qr (to.xo) — _ SUP [u(t. )]ce (B, (xo)-
te(to—ro o)
(1060, (tox) = S0P [u (- V)ce(io—roir0))-
X€Byr(x0)

If B (or @) is an integer, the above seminorms mean the Lipschitz norm of DI8I=! (or 8!%/™1). If there is
no subscript about the region where the norm is taken, then it means the whole domain where the function
is defined (e.g., R? or (—tp, 0] x R? for some o > 0).

e Wesay u € Cl’”+(Q1) if u e CH°%¢(Q)) for some small & > 0.
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* We will also use the following Lipschitz—Zygmund seminorms. Let 2 C R4 be a domain, r > 0, and
Q = (tg—r,t] x Q. For a, B € (0, 2), we define

x lu(t, x1) +u(t, x3) —2u(t, x3)|
[u]Aﬁ(Q) = sup [u(l? ° )]AB(Q) == sup sup p ,
te(to—ro to] te(to—ro to) X1,X2,X3€Q |X1 —X2|

X17£X3, X1+X3=2X>

[u]t _ sup[u( X)] = sup sup |u(t1,x)+u(t3,x)—2u(t2,x)|
o - * Aa — (7; i
AT O xeR ((tO 7% o)) xXeEQ # ,tz,t3€(t()—r0,l‘()] |tl - t2|(¥

t#t3, t1+H13=2t2

U] s, = sup lu(ty, x1) + u(ts, x3) —2u(tz, x2)|
AP Q) —

(11.,%1),(12,%2),(3,%3)€Q |ty — 2] + [x1 —x2|#
(t1,x1)#(t3,x3), (t1,x1)+(13,x3)=2(12,x2)

’

We will frequently use the identities
2 (u(t,x +2771) —u(t, x)) — (u(t, x +1) —u(t, x))

J
=Y 2K Qu( x+27* D —u(t x+27* D —u (. x)). (@1
k=1

2 u(t—277,x)—u(t,x)) — u(t—1,x) —u(t,x))

j
= Z 2 ue—27F, x)—u(e—27F 1 x)—u(t, x)), (2-2)
k=1

which hold for any unit vector / € R? and j € N.
Lemma 2.1. Let @ € (0, 0) be a constant. Let Q be a convex cylinder such that Q L CcQCo;.

(1) When o € (0, 1), we have

o0
[uly.0 + 19:ull L) = C Y 25O sup inf [u— ple a0, 4 (0.x0) + C Il Los(@,1/0)> (2-3)
=0 (to,x0)€Q PET1

where C is a constant depending only on d, o, and a. Moreover, the modulus of continuity of 0,u is
bounded by the tail of the summation on the right-hand side of (2-3).

(ii) When o € (1,2), we have

[”]):;;Q +10:ullL (o) + [Du]tﬂ%l;g

o0
< C Z Zk(a_a) sup lng [u - p]%,a;QZ_k (t9,x0) + C”””LOO(Qz)v (2'4)
k=0 (to,x0)€Q PE71

where C is a constant depending on d, o, and . The modulus of continuity of dsu is bounded by the
tail of the summation above.
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(iii)) When o = 1, we have

o0
DUl L0y + 10:ttll o) < C Y 2K sup  inf [u = plaai0, 4 (t0.x0)
k=0 (to.x0)eQ PP

+C sup lu(t, x)—u(t,x")], (2-5)
(tsx)r(t/sx/)eQZ

max{|t—t'|,|x—x'|}=1

where C is a constant depending on d, a, and 6. The modulus of continuity of d;u and Du are
bounded by the tail of the summation above.

Proof. We first prove the estimate of d;u for o € (0, 2) by showing that

o0
18:ullz (o) < C Z k=) g inf [u—p]’%;QZ_k (toxo) T2 Sup  |ulto—1,x0) —u(to, Xo)l.

k=0 (to,x0)eQ Pt (t0,x0)€Q
(2-6)
Indeed, from (2-2),
2 u(t =277, x) —u(t, x)|
o
<lut—1.x)—u@. )|+ > 2 2u —27F x) —u@e - 275 x) —u(t.v)|
k=1
S ok(1-2)
< _ _ k(1=3)1,1¢ N
<lu(t—1,x)—u(t.x)|+C ]; 2 Wlyero (g, it (2-7)

where C only depends on o and k* = [(k — 1) /0], i.e., the largest integer which is smaller than (kK —1) /0.
The right-hand side of the above inequality is less than

o8}
_ _ (k*o+o)(1-2)p, 1t
juz —=1,x) u(r,x)|+cl;2 Wlhero o, v ttoon

o0
< —1 — 2k (0=) nf 1y — pl '
<lu@t—1,x)—u(, x)|+C ]; plélpt[u p]AO‘/U(QZ_k*(t,x))

By using the definition of k£, it is easy to see the second term on the right-hand side of the above inequality
is bounded by

o0
C 2k@=o) qup inf [u— plb. :
L g A e

Therefore, by sending j — oo in (2-7), we prove that ||0;u| 1. (@) is bounded by the right-hand side of
(2-6). Since

: t
plengt [u o p]%;Qz—k (tO,XO) S plengt [l/l B p]%’a;Qz—k (to,x0)*

. t .
,,légt [~ p]%;QZ—/c (t0,%0) = plengl [t — p]%sOt;Qz—k (t0,%0)>

the right-hand side of (2-6) is bounded by that of (2-3)-(2-5). We obtain the bound of ||d;ul|z__(g)-
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Next, we bound the modulus of continuity of d;u in Q. Assume
lt—t'| + |x —x'|% € [27¢+D 27 for some i > 1.
From (2-2), forany j > i + 1,
2w =277, x)—u(t,x)) = 2" (u(t =27, x) —u(t, x))
J

= > 2*NQu—27F ) —u( =27 x) —u(t. x),
k=i+1

and the same identity holds with (¢, x) in place of (¢, x). Then we have
10,u(t, x) — d;u(t’, x")| = lim |27 (u(t =277, x) —u(t,x)) =2/ (u(t' =277, x") —u(t’, x"))|
j—o0
<122 (u@ =27 x) —u(t,x)) = 2" (u(@ =271, x") —u(t', x"))|

o0

+ C su 2k(1_%) u ! oo y
k=§—l (to,xor))eQ [ ]A 17(Q,—x (10.x0))

where k* is defined above. By the triangle inequality, the first term on the right-hand side is bounded by
2u(t =270 x) +u(t, x") = 2u(@, %) + 2 lu(t’ =27 x") = 2u(7, X) + u(t, x)|,
where f = (t +1' —27%)/2 and X = (x + x’)/2. This is further bounded by

2i(1-5) sup [u]

a/o.a . ,
(to,x0)€Q A (@,—i* (10,X0))

where i* = [(i — 1)/o]. Therefore,

o0
|0,u(t,x)—0,u(’,x")| <C Z sup 2k(1_%)[u]Aa/(r,a(Q2_i* (t0.%0))

k=i (0,x0)€Q
S (1-2)

<C sup 2k0=3) inf u—ple go v ,
k=i (tOsXO)GQ DPEPy U’a,inl (O’XO)

which, from the definition of i *, converges to 0 as i — oo.
In the rest of the proof, we consider the three cases separately.

Case 1: 0 € (0,1). The estimates of [u]} are the same as [Dong and Zhang 2016a, Lemma 2.1] and we
only provide a sketch here. Let (¢, x), (¢, x") € Q be two different points. Suppose 4 := |x —x'| € (0, 1).
Since

h_a|u(tv X,) _u(tv X)| = sup ha_a[u(tv ')]oe;Bh(x)»
xeQ

by taking the supremum with respect to z, x, and x’ for < 1 on both sides, we get

)
[u5:0= sup  sup K*Tulg, <C 2K g [l -
70 (to,x0)€Q 0<h<1 ;0 (t0,%0) Ig) (to.x0)€0 a; 0,k (t0,%0)
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Notice that

[u]z;QZ_k (t(),XO) = piél,]gt [u - p]z;QZ_k (t(),XO) 5 plél,gt [u - p]%,a;QZ—k (tO,XO) .

The proof of Case 1 is completed.

Case 2: 0 € (1,2). Similar to the previous case, we only provide the sketch of the proof following that
of [Dong and Zhang 2016a, Lemma 2.1]. Let £ € R? be a unit vector and & € (0, %) be a small constant
to be specified later. For any two distinct points (7, x), (¢, x’) € Q such that 7 = |x — x| < % there
exist X, X' € Q such that |[x — X| < eh, X + ehl € Q, and |x' — X'| < eh, X’ + ehl € Q. By the triangle
inequality,

R~ | Dgu(t,x) — Deu(t,x")| < Iy + I + I, (2-8)
where

Iy :=h'""%|Dou(t, x) — (h) " (u(t, X + eht) —u(t, X))|.

I :=h""% | Dou(t,x") — (eh) " (u(t, X' + ehl) —u(t, X)),
I3 := h'7% (eh) Y (u(t, & + eht) —u(t, X)) — (u(t, X' + eht) —u(t, X))

By the mean value theorem,
I+ 1, <27 ulf. o (2-9)

Now we choose and fix an ¢ sufficiently small depending only on ¢ such that 27g° 1 < % Using the
triangle inequality, we have

I3 < Ch7 (|u(t, % + ehl) + u(t, X") = 2u(t, X)| + |u(t, X" + ehl) + u(r, ) — 2u(t, X)|),
where ¥ = (X + ¢hl + X')/2. Thus,

I3 < Ch¥Ou(t,)] (2-10)

X
A% (Qn(,%))
Combining (2-8), (2-9), and (2-10), we get

o0
[ul*.n <C KO- sup  inf u—plX., )
i k2=;) (to.x0)€Q PEPx % Comk (fo.%0)

Because

piengx[u N p]zin—k (t0,x0) = pi€n7gl [ — p]%,ol;Qz—k (#0,x0)>

we bound [u]?. o by the right-hand side of (2-4).

It follows from [Krylov 1996, Section 3.3] that [Du]’

=10 is bounded by |[|d;ul|r . (0) + [“]ﬁ;Q-

Therefore, (2-4) is proved.

Case 3: 0 = 1. We give the estimate of || Dul|r . It follows from (2-1) that

J
Hu(t.x +2770 (. )| < ult.x + 0 —u(t. )1+ Y0 2O e g, (xra-reyy
k=1
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Taking j — oo, we obtain that

o0
|Dullr.. <C Z Hk(1-a) sup inf [u —p]z;Qrk toxo) T sup lu(t, x) —u(t, x")|.

=1 (to.x0)€Q P<Px (t.%).(t.x)€Q>
[x—x"|=1
The estimate of the continuity of Du is the same as d;u, and thus omitted. O

Let n be a smooth nonnegative function in R with unit integral and vanishing outside (0, 1). For R > 0
and o € (0, 1), we define the mollification of u with respect to ¢ as

u® (i, x) = / u(t— R%s, x)n(s)ds.
R

For the case o € [1,2), we define u® differently by mollifying the x-variable as well. Let ¢ € Cg°(B1)
be a radial nonnegative function with unit integral. For R > 0, we define

u® (1, x) :/ u(t — R%s,x — Ry)n(s)¢(y) dyds.
Rd-i—l

The following lemma is for the case o € (0, 1).
Lemma 2.2. Let o € (0,1), a € (0,0), and R > 0 be constants. Let py = po(t) be the first-order Taylor
expansion ofu(R) at the origin int and ti = u — pgo. Then for any integer j > 0, we have

[a]%,a;(—RU, 0)xB,; » = Cpiengt[“ - p]%,a;(—RU, 0)XB,j o (2-11)
where C is a constant only depending on d and «.
Proof. 1t is easily seen that # is invariant up to a constant if we replace u by u — p for any p € P;. Thus
to prove the lemma, we only need to bound the left-hand side of (2-11) by

C[u]%,a;(—RU, 0)XB,; p*

Since &t = u — p(¢), it suffices to observe that

[PVl go,0y = R7™18:(0,0)] = Clul O

S0R”
The following lemma is useful in dealing with the case o € (1, 2).

Lemma 2.3. Leta € (0, 1) and o € (1, 2) be constant. Then for any u € C' and any cylinder Q, we have

o0 o0
2k@=) qup  [u— po]*. <C 2k©@=®) qup inf [u— pI~. , (2-12)
];) (t(),X())EQ o; Qz—k (t(),X()) I;) (t(),X())GQ PEPx aan—k (t()y-x())
where pg is the first-order Taylor’s expansion of u in the x-variable at (ty, xg), and C > 0 is a constant
depending only on d, a, and o.

Proof. Define

by =250 qup inf [u— p]

x
(to,x0)eQ PEPx a;Q,—k (f0,x0)"
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Then for any (9, xo) € Q and each k =0, 1, ..., there exists p; € Px such that
. X —k(o—a)
[u pk]a;QZ—k (t0,%0) = 2by2 :
By the triangle inequality, for £ > 1 we have
Pt = PkTii0,, (rouxg) = 2662707 4 20y 277D, (2-13)
It is easily seen that
[Pr—1 = PrlG:0, s (tox0) = [VPE—1— Vpye|2~ k=D,
which together with (2-13) implies
[Vpr—1 = Vpkl = C27¥OD (g + ). (2-14)

Since ) ;. by < oo, from (2-14) we see that {Vpy} is a Cauchy sequence in Re. Let ¢ = q(to, x0) € R?
be the limit, which clearly satisfies for each k > 0,

o0
lg—Vprl <C Y 277C@Vp;.
j=k
By the triangle inequality, we get

[—q- X]z;QZ_k (to.x0) = [t — F‘k]g;QZ_k (to.x0) T [k —q- x]z;Qz—k (t0,X0)

oo
< k(-0 Z 2-ie=Dp, < Co klo—a) (2-15)
j=k
which implies
luto. ) = ulto. X0) = 4 - (x = x0) | L (B, 4 (xopy < C27%7

and thus ¢ = Vu(tg, xo). It then follows from (2-15) that

00 00 00
Z 2klo=e) sup  [u— PO]§~Q i (t0,x0) = ¢ Z 2ke=D Z 2_j(a_1)bj
k=0 (t0,x0)€Q G k=0 j=k

o0 o0
=C Y 27/ p; N ke < ¢
Jj=0 k=0 j=0

This completes the proof of (2-12). O

J

The last lemma in this section is for the case when o € [1, 2).

Lemma 2.4. Let @ € (0,1), 0 € [1,2), and R > 0 be constants. Let pg = po(t, x) be the first-order
Taylor’s expansion of u® gt the origin and it = u — pgy. Then for any integer j > 0, we have

it (¢, x) —a(t), x")]| )
sup e & = C inf [u _p]%,a;(—RU, 0)XB,j o (2-16)
(t,%),(t,x ) (=R, 0)x B, , |X —X'|* + [t —1'|o PEPI
(t,x)#@',x"), 0<|x—x'|<2R

where C > 0 is a constant depending only on d, a, and o.
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Proof. 1t is easily seen that # is invariant up to a constant if we replace u by u — p for any p € P;. Thus
to show (2-16), we only bound the left-hand side of (2-16) by

Clule o;(—R7,0)xB,; -

Since @ = u — py, it suffices to observe that for any two distinct (¢, x), (#, x") € (—R,0) x B,; g such
that 0 < |x —x'| < 2R,
[Po(t.x) = po(t".x)| = |x = x| Dut® (0, 0)] + |t — '] 13, (0, 0)|
< Clx =¥ R ulf g, + Cle— 1RO ull

< C(lx =X+t = )% U] 050 O
3. Dini estimates for nonlocal nonlinear parabolic equations

The following proposition is a further refinement of [Dong and Zhang 2016b, Corollary 4.6].
Proposition 3.1. Let o € (0,2) and 0 < A < A. Assume for any € A that Kg only depends on y. There
is a constant & depending on d, o, A, and A (uniformly as 0 — 27) so that the following holds. Let
a € (0,&) such that 6 + « is not an integer. Suppose u € C1+%’”+°‘(Q1) NCo2(-1,0) x RY) is a
solution of

d;u = inf (Lgu + in Q1.

t ﬁeA( pu+ fp) in Q4
Then,
et .
()14 % @010, SC Y 27OM; +C supl /ol w01
j=1

where
lu(t, x) —u(t', x")|

M; = sup &
(t.0),(t,x)e(=1,00xB,; |x —X'|* + [t —1'|o
(t,x)#({t,x"), 05| x—x"|<2
and C > 0 depends only on d, A, A, a and o, and is uniformly bounded as 0 — 2~.

Proof. This follows from the proof of [Dong and Zhang 2016b, Corollary 4.6] by observing that in the
estimate of [/ B]%,oc;Ql , the term [“]%,a;(—l,o)x B,; can be replaced by M. Moreover, by replacing u by
u—u(0,0), we see that

”u“%,a;(—l,o)sz = C[”]%,a;(—l,O)sz- 0

In the rest of this section, we consider three cases separately.

The case o € (0, 1).

Proposition 3.2. Suppose (1-1) is satisfied in Q51/0. Then under the conditions of Theorem 1.1, we have

o
w130, T 19l Los:01)s < Cllule o +C Y 0p(275), (3-1)
k=1

where C > 0 is a constant depending only on d, A, A, wq, and o.
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Proof. For k € N, let v be the solution of

{8tv = infge4(Lg(0,0)v + f3(0,0) =9 po) in Qp—x,
v=u—po(t) in (=27%9,0)x BS_, ) U ({t=—27%} x B,),

where Lg(0, 0) is the operator with kernel K (0,0, y), and po(¢) is the Taylor’s expansion of u®™ in¢
at the origin. Then by Proposition 3.1 with scaling, we have

o0
k—j k
Vi+¢ atas0, 4 <€ D247 7M; + CH e o, (3-2)
j=1
where a € (0, @) satisfying 0 + o < 1,

(2, x) —u(r', x")|

M; = sup &>
(t,x),(t/,x’)e(—Z_k”,O)Xsz_k |X — x’|a + |[ — [’l o
(t,x)#£(t',x"), 0<|x—x'| <2~k +1
and i = u — py.
Let ko > 1 be an integer to be specified and p; = p;(¢) be the Taylor’s expansion of v in ¢ at the
origin. By the mean value formula,

) < y—(k+ko)(o+a) [V]) 42

”v_pl ||Loo(Q2—k—k0 :0'+01;Q2—k—k0’

and the interpolation inequality

)+ y—(k+ko)o

k+k
[v—rilewo s, = C *Fkoa |y — p, | Zoo(Q@, sk, [v— Pl]l—f—%,a—f—a;QZ_k_kO)’

we obtain

< cok +k0)a[

[U_pl]%,a;QZ_k_kO v]1+%,a+U;Q2_k_k0‘

From Lemma 2.2, we have

M; = Cpiengt[” = Ple gy(—2-ko 0)xB,; . = Clule a;—2—ko 0)xpd- (3-3)

These and (3-2) give

[U - pl]%,a;Qz_k_kO

k
< o~ kHkIa R "o (k=D g 4 ComEFROT e ko gyt + C2TF e i,
j=1
k .
< ComEHh0o X "ok gy 4 com (RO y]a  + C2TR e g - (3-4)
Jj=1
Next, w := u — po — v satisfies

w,—MTw<Cy, in Os—k.
Wy - M w> —Ck in Qz—k, (3_5)
w=0 in (=27%9,0)x BS_, ) U ({t=—27%} x B,—),
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where M™ and M~ are the Pucci extremal operators, see, e.g., [Dong and Zhang 2016b], and

€A

It is easily seen that

w .

Cr w27+ Cwa(2_k)( sup Z ZJ(U_a)[U]z;QZ_j (to.x0) T ||u||Lc>o)'
(t0,x0)€Q5—k j—9

Then by the Holder estimate [Dong and Zhang 2016b, Lemma 2.5], we have

[w]%,o{;Qz_k S Cz—k(a—a) Ck
w .
sup 2/ (a—a)[u]z;Qz_j (toxo) Tl ||Loo)i|

<2kl [wf Q7Y+ wa(27F) (
(t0,%0)€Q5—k j =0
(3-6)

for some o > 0. This o can be the same as the one in (3-2) since « is always small. By the triangle

inequality and Lemma 2.2 with j =0
Vg0, =Wle a0, , +14—Pol2.ao,
<[wle a0, , +C pigg[ [u—ple a0, - (3-7)

Combining (3-4), (3-6), (3-3), and (3-7) yields

2(k+ko)(0—ot)[u — po— pl]%,ot;szkka

— 2(k+k0)(‘7_“)[w +v— Pl]%,a;QZ—k—ko

k
ket k=)o
< Co~ktkoa ) " yk=po Jinf [u = Pl a;—2-ka,00xB,,
j=1
+Com TRy o 4 C2TRHROTD inf fu— ple i, +C2VOTDp(27F)

o0
+ C2k°(”_°‘)a)a(2_k)( sup > OppE N IIuIILOO).
(tg,x0)€ Qz—k =0 »=27 (1g.xq)

(3-8)

Let £o > 1 be an integer such that
1 1 <
=t 2 o =
I=Lp+1

Set Qe‘):Q% and for/ = {4y + 1,45+ 2,..., we define

l
oe(h 3 el

j=to+1

=
3
A
N —
_|_
2|~
N —

Jj={o+1
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The choice of £ will ensure that Q! C Q4 for all / > £, and the definition of Q' will ensure that for
[ >4y, k>1+1, there holds

0! + 0,k (to. x0) C Q' forall (19, x0) € O'.

By translation of the coordinates, from (3-8) we have for any / > £y and k >/ + 1,

plktko)o—e) gy [M—PO—PI]%,a;Qz—k—ko(’0”‘0)
(t(),X())EQl

k
= Cz—(k+k0)a sup Z 2(k—])0' 1€n7£ [u_p]%,a;(to—sza, t())Xsz_k (X())+C2_(k+k0)a[u]%,a
(t0,x0)€Q! j =9 pEF

+C2ko(o—e) [wf 27k
o0

+w 2"‘( su 270=D) Snf lu—ple 4.0 +|u )] 3.9

ol )(to,xo)ele+1j;o PEPt[ P20, (to.xo) Il Lo (3-9)

Then we take the sum (3-9)ink =/+ 1,/ +2,... to obtain

o0
Z y(k+ko)(o—a) sup inf [u — p]%:OGQZ—k—kO (to.%0)

k=141 (t0,x0)€Q! PEPt
o0 k .
=C Z a (ko Sup Z A leng [t — p]%sa;(fo—2_’“’, 10)X By j— (x0)
k=I+1 (t0,x0)€Q" j—9 PP

o0
+C2_(l+k0)a[u]%’a+C2k0(a_a) Z a)f(Z_k)
k=I+1
(o,]

o0
+ C2kolo—a) Z wa(z—k)(z yi(o—a) sup 2171;: [u— p]%,a;Qz_j (to,x0) T ”u”Loo)‘
k=141 j=0 (to,xo)eQ!+1 PET

By switching the order of summations and then replacing k by k + j, the first term on the right-hand
side is bounded by

o0 o, ¢]
C 2 koa Z 27Jo Z 2k(o—a) sup inf [u— ple g.(y—2-ko 19)x B ik (x0)
=0 k=J (IO’XO)GQI PEPt 7 2

o0

o0
—k _j k(o—a) .
<C2 oc Z 2% Z AR sup , plél'lgt[u - p]%,(x;([o—sz”, to)XBz_k (x0)
=0 k=0 (t0,x0)€Q

o0

< C27Roe N9k qup inf [u— pla b0« (t0uxo)-
k2=;) (t0.x0)eQ! PPt e
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With the above inequality, we have

o0
k+ko)(o— :
Z 7 0)(o—a) sup lplgg,[u_p]%’“;Qz—"—ko(tO’xO)
k=I+1 (t0,x0)€Q

o
< 2 koo pjle—e) oy inf [u — ple 4- .
Z (to,xo)pte peP,[ p]U’a’Qz—J (t0,x0)

j=0
00
+C2—(l+k0)a[u]%’a+C2k()(0—06) Z a)f(2_k)
k=I+1
[e)e] 00 .
+C2kolom) Y a)a(Z_k)(Z 2707 sup inf = pleaio, ;o) t llullLoo)-
k=I+1 j=0 (to,x0)e QI+t =T

The bound above, together with the obvious inequality

I+ko
Z j(o—a) sup ing [u— p]%,a;Qz_j (toxo) = C2(1+ko)(a—a)[u]%’a’
j=0 (to,x0)eQ! PEM

implies

o0

Z 2j(0_0‘) sup inf [u — p]%,a;QZ,j (t0,x0)

j=0 (to,x0)eQ! PP

o0
< C2 ko Z 27— gyp inf [u— ple o:0, ; (t9,x0)

j=0 (t0,x0)eQ!+1 PEPt

o0
+ C2UHk o=y C2REmD N ") (27F)

k=l

00 00
+ C2kolo—a) Z a)a(Z_k) (Z yj(o—a) sup inf [u — p]%,ot;Qz—j (to,x0) T ||u||LOO).
k=I

=0 (to,x0)€Q!+1 PEP1

By first choosing k¢ sufficiently large, and then £, sufficiently large (recalling that / > £), we get

o0
Z ZJ (U_a) Sup inf [u - p]g’a;Q —k (tO,X())
=0 (t0.x0)eQ! PEP o

R T . - o o
< Z Z yjlo—a) sup inf [u — p]%,a;szk (to.x0) + C2U+ko) (o Ot)”u”%,a +C Z a)f(2 k)‘
io (t0,x0)€QI+1 PEP1 k=1

Multiplying both sides by 47/, taking the sum in /, we have

o o
4713 "2/ qup inf [u = ple a0, 4 (toxe) = Cllullz.o +C Y wp27F). (3-10)
j=0 (t0,x0)eQ! PE™t k=1

This, together with Lemma 2.1(i) and the fact that Qeo =0 L gives (3-1) and the continuity of d,;u. O
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The case when o € (1, 2).

Proposition 3.3. Suppose (1-1) is satisfied in Q,. Then under the conditions of Theorem 1.1, we have

foro e(1,2)

o0
[WEss0,, + DUty A1t L@r) = Cllullz o+ C " w0 275),

o—1.
—01/2
7 k=1

where C > 0 is a constant depending only on d, A, A, wq, wp, Ny, and o.

Proof. For k € N, let vz be the solution of

d,upr = infge4(Lg(0,0)var + f5(0,0) + bg(0,0)Du(0,0) — 9, po) in Qp—x.
VM= EMm in (=27%9,0)x BS_, ) U ({t=—2"%} x B, ),

where M > 2|lu — po|| Loo(Q,—) 18 @ constant to be specified later,

gm = max(min(u — po, M), —M),

(3-11)

and pog = po(t, x) is the first-order Taylor’s expansion of u@™ at the origin. By Proposition 3.1, we

have

o0
[UM]1+%>“+‘7?Q2—/€—1 =C Z 2(k_])an + CQkU[UM]%,a;Qz—k’
Jj=1

where « € (0, min{&, (0 —1)/2,2—0}) and

|u(t,x) = po(t, x) —u(t’,x") + po(t’, x')|
M; = sup

% ’
(t.3),(t'x")€(—27K%, 0)x B, [t —1']o 4 |x —x'|*
(t,x)#(t',x"),0<|x—x'| <2~k +1

From Lemma 2.4 with o € (1, 2), it follows
M] E C pien’}gl [u —_ p]%’a;(_sz(r’ O)Xsz—k .
In particular, for j > k, we have

Mj S C[u]a a;(—Z_kO,O)Xle’

o’

and thus,

o
[UM]I-Fg,Ot-i—U;QZ_k_] =C Z 2(k_j)UMj + Czka[vM]%,a;QZ_k

o
j=1

(3-12)

k
<C Y 2k 4 Clula gs(—2-ka,0pxrd + C2*loprle gig, - (3-13)

j=1
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From (3-13), and the mean value formula (recalling that @ < 2 — o),

k
loas = PillLac(o, ki) < C2~EHRI@HD Y 7 olk=iopy;
j=1

2—ka—k0(0+a)[

(27 0)xd + €

n Cz—(k+ko)(0'+ot)[u]g UM]%,a;Qz—k’

where p; is the first-order Taylor’s expansion of vys at the origin. The above inequality, (3-13), and the
interpolation inequality imply

[UM - Pl]%,oz;Qz_k_kO

k
< cy~ktko)a N k=D g 4 Cz—(k+k0)"[u]%,a;(_2_kq oy +C27 % oprle g o (3-14)
j=1

Next was := gpm — v satisfies

drwpr < MYwpr 4+ hpr +Cr in Oy,

drwpr = M- wpr +hpyr —Cr in Qz—k,

wyr =0 in (—27%9,0) x BS_, ) U ({r=—27} x B, 1),

where

har = MY (u—po—gnr),  hag i= M™(u— po—gnr).
Here

Cy = ;up |/ — 78(0,0) + bgDu —bg(0,0)Du(0,0) + (Lg —Lﬁ(o,()))uHLoo(Qz_k).
€A

It follows easily that
Ck <0r Q) + o 7)1 DullL 0, ) + sup 168002 [ DU)a g0,

oo

—k jlo—a)y,, X
+Caq(2 )(goxf)‘ipg k;z [u pto,xo]a;gzj(,o,x(,)+||Du||Loo<Qz_k)+||u||Lw),
s 2— ]=

where pr xo = Pig,xo(X) is the first-order Taylor’s expansion of u with respect to x at (fg, Xo). From
Lemma 2.3, we obtain

Cr <07 + 0 @) DullL o0, ) + sup IbgllLo2 **[Dule o0,
00
+ Cwa(275) (]ZO 27 ("“")(m,x OS)uesz_k Jinf (1= plaio,; toixo) T IPUNLac@yi0 + Il ”Loo)-
By the dominated convergence theorem, it is easy to see that
s o0,y 1harllLosio, ) =0 as M — oo,
Thus similar to (3-6), choosing M sufficiently large so that

s lzoc@,—s I1haellLoeco,—4) = 3Ck-
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we have
[wM]%,a; 0,k

<ok [w,«(z—") + (@527 + 0 QTN DUl Loy0,_) + 27 Dule a0,

o0
n a)a(Z_k)(Z 2/ qup inf [u— p]z;QZ_j (toxo) T ||“||Loo):|- (3-15)

j=0 (thXO)Gszk PEPx
Clearly,
. x .
plengx[u - p]OUQz—j (t0,x0) = p1€n7£1 [Z/l - p]%,a;QZ_j (t0,x0)* (3_16)

From the triangle inequality and Lemma 2.4 with j =0,
[UM]%,a;QZ—k = [wM]%,a;QZ—k +[u— PO]%,a;Qz—k = [wM]%,a;Qz—k + CpiGngl [ — p]%,a;Qz—k-

Forall/ =1,2,..., we define Ql = Q_,—1. Combining (3-14), (3-15) with (3-16), and (3-12), similar
to (3-9), we get thatforall / > 1 and k >/ + 1,

k+ko)(o—a .
2 )(m,asc;l)pegz p??gl[u_p]%’“;gz*kﬁk) (t0x0)
k
< 2 ktko)e  gyp 262D inf [u—pla :(to—2-0 1)< B
(l‘ogxo)GQlj:o PEPL o ,

+ 27y g o 4 COTRHOTDDuy 14

27—k (xqg)

+ C2kolo—a) |:wf(2_k)+(wb Q) +waFNIIDull i+

(o)
+wa(2_k)(Z2J(a_a) sup inf [U—P]f‘,,a;QZ_j(t(),x())+||u||Loo)i|- (3-17)

izo (t0.x0)€Q!+1 PEP1

Summing the above inequality in k =/ 41,/ + 2, ... as before, we obtain

o0
k+ko)(o— ,
Z o (k+ko)(0—a) sup lplengl[u_p]%’a;QZ_k_kO(IO’XO)
k=I+1 (t0,x0)€Q

o0
< C2 koa Z /o~ sup inf [u—p]g’a;Qz_]. (t0.%0)

j=0 (to,x0)eQ!+1 PEP1 7

o0
+C2 horDapy g 4 2Rl K" 2—k“[pu]%,a;Ql+1
k=I+1

o0
+C200E= N (0 27F) + (0, ) +0a TN | Dull L or+1)
k=I+1

o0 oo
+C2k0(0—a) Z o (2_k) (Z 2J (0—a) sup leng [u_p]z;Qz—j (t0,X0) + ||u ”Loo) y (3-] 8)
k=l+1 =0 (to,x0)€Q!+1 PEF
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and

jlo—a) _
Z ’ (20, )Scl()l)P;Ql P1€n7£1 lu ]J @30, (10,%0)

< c2ko+De—a, le o + 2 ko Z 2/ qyp inf [u — ple

50, (tg,x
Jj=0 (to,x0)€Q!+1 PEP1 @2 (l00)

+ CZkO(U_a)_la[Du]g’a;QHl

o0
+ 2R N (0, 27F) + (0, 7F) + 0a @) | Dl gr+1))

k=I1+1
+ C2ko(o—0) Z wa(2” ")(Z 2O sup inf u—plyp xO)+”””Loo)
eyt =0 (to.x0)eQ!+1 PEVI

By choosing k¢ and / sufficiently large, and using (2-4) and interpolation inequalities (recalling that
o < (o0 —1)/2), we obtain

o0
pilo—a) oy inf [u— 0.
j;() (to,xo)P;Ql P€7’1[ Pl o225 Qp—j (f0,X0)
1 o o
=D Zj(a_a)( WP Jinf 4= Pl a:0, s o.x0) + C2UTVTullz o +C Y0275,
j=0 fo,X0)€ k=1
Therefore,
o
i Z VO sup - inf 4= plz o, o) < Clullza +C Y 0r@7H,  (-19)
j=0 (t0,x0)€ Q! k=1
which together with Lemma 2.1(ii) gives (3-11) and the continuity of d,u. O

The case when o = 1.
Proposition 3.4. Suppose (1-1) is satisfied in Q. Then under the conditions of Theorem 1.1,

o0
1DUllLo(@1)2) + 10Ul Ls(@1)2) < Cllitlae +C Y wp(275), (3-20)
k=1

where C > 0 is a constant depending only on d, A, A, Ny, wg, and wy,.

Proof. Set by = b(0,0) and we define
(t,x) = u(t,x —bot), fp(t,x) = fa(t,x —bot), and b(t,x) = b(t,x —bot).
It is easy to see that in Qg for some § > 0,

0:(t, x) = 0su(t,x —bot) —boVu(t,x — bot),
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and for (¢,x) € Q5—«,
| /(. x) = f3(0.0)] < wp((1 + No)275),
|6 — bo| < wp((1+ No)27).
It follows immediately that
iy = igf(i,ga + fp+ (b —bo) Vi), (3-21)

where L is the operator with kernel a(z, x — bot, y)|y|~4~°. Furthermore,
IDullLo + 19rullLog = (1+ No)(I Dl Log + 10:21l| Lo )-

Therefore, it is sufficient to bound . In the rest of the proof, we estimate the solution to (3-21) and abuse
the notation to use u instead of # for simplicity. By scaling, translation and covering arguments, we also
assume u satisfies the equation in Q5.

The proof is similar to the case o € (1, 2) and we indeed proceed as in the previous case. Take pq to be
the first-order Taylor’s expansion of u@™) at the origin. We also assume that the solution v to the equations

{atv = infpe4(Lp(0.0)v + f5(0.0) — 9 po) in Qyx.

v=u—po in ((—27%9,0) x BS_, ) U ({r=—27} x B, )

exists without carrying out another approximation argument. By Proposition 3.1 and Lemma 2.4 witho =1,

o0
Plitata:0, ko <C Y25 Mj+C2Hlagso,
=1

o0

k—j k

S C Zl 2 J p1€n£1 [u - p]a,a;(—z_l(,O)Xsz_/( + C2 [U]a,a;QZ_k
]=

k
k—j k
<C Y ok p?gl[u ~ Plaas—2-*.0)xB,;_ T Cliloa + C2*Waa;0, 4 -
j=1

(3-22)
From (3-22) and the interpolation inequality, we obtain

[v— pl]ot,Ol;Qz—kka

k
< 27 *FR N "oKT inf [u— ply -2k 0)x B

DPEP] 2i—k

+C2 Py g0, +C2ETROR], 4, (3-23)
j=1

where p; is the first-order Taylor’s expansion of v at the origin. Next w := u — po — v satisfies (3-5),

where by the cancellation property,

Cr = wp((1+ No)2™) + wp (1 + No)2 ™) | Dullz 0, 1)
o0

—k j—a) S b
#Co4 N2 (s 32 int i plg, my + i)
> 2=k j=0
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Clearly, for any r > 0,
we((1 + Ng)r) < (24 Np)w.(r).

Therefore, similar to (3-6), we have
[Wla.0:0,

< co7ki-) [a)f(z—k) +0p Q7)1 DUl L o0,—1)

o0
+w (2—")( 2/0=0)  qup inf [u—pl*., + Ju| LOO)] (3-24)
a ;) (f0.%0)20, 1 P<Px a;Q,—j (to,x0)

From (2-16) and the triangle inequality,

[U]a,oc;Qrk = [w]a,a;Qrk +[u— PO]a,a;Qrk = [w]a,a;Qrk + Cpi€n7£1 [u— P]oc,a;Qrk .

Forall/ =1,2,..., we define Ql = Q{_,—. Similar to (3-9), by combining (3-23) and (3-24), shifting
the coordinates, and using the above inequality, we obtain for all / > 1 and k >/ + 1,

plktkoi=e) gy inf [u — .
(f(),xo)P;Q’ pePl[ p]a’a’QZ_k_kO(to,xo)
k
—(k+ko) k—i -
<C2 0)a sup Z 25— plen7£1 [u - p]a,a;(to_z—k’to)Xsz_k (x0)

(t0.x0)€Q" j—9

1 C2ko(1-e) |:60f(2_k) +wp 27 Dull (i1

o0
+w, (27K ( /(1) su inf [u — p* _ + |lu|l )]
“ : jg(:) (to,xo)ele+1P€7’x[ p]a’QZ_’(tO’XO) lullzoe

+ 2~ ktkoap,), 4. (3-25)

which by summing in k =/+ 1,/ 4+2,... implies

o
k+ko)(1— :
Z o (k+ko)(1—a) sup ]plengl[”_P]a,a;QZ_k—ko(lo,XO)
k=I+1 (t0,x0)€Q

[e.¢]
< 2 ko Z 2/(1-a) sup inf [u— ploa;0,_; (t0,x0)

j=0 (to,x0)€Q!+1 PEP1

(o,]
+C2—(k0+l)a[u]a’a+C2k0(1—(x) Z a)f(2_k)
k=I+1

oo
+C2ko(m) " |:wb(2_k)||D””Loo(Q’+l)+wa(2_k)

. 7i(1—a) sup inf [u— p]*. ; + [lullL )]’
(Jg(:) (to,x0)€Q! 1 DEPx O!,Qz—j (to0,x0) oo
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where for the first term on the right-hand side, we replaced j by k — j, switched the order of the
summation, and bounded it by

7—(k+ko)e 27 sup inf [t — pla,a:0,_; (t0,x0)
Z 12(:) (to,x0)€eQ! 1 PEP L5 —j U0,X0

oo oo
= ko Z 27 sup inf [u— plo,a;0, ; (t9,x0) Z ke
=0 (0, x0)eQ!+1 DPEPy gt

< 27k N pill—a) gy inf [u— plya:o._ - )
JZO (to,x0)€Q!+1 PEP1 .03 05—j (fo,%0)

Therefore,

2707 s inf [u— '
Z (l‘o,xo)pte PEP [ p]a“Qz—J (t0,x0)

< C2 ko 7Jj(1—a) sup inf [ plao. |
JX(:) (to,x0)€Q!+1 PEP a,0;0,—; (t0,X0)

o0
2Ry, 4 C2R =0 N g (27K
k=Il+1

o0
+C2k01= NN @) | Dull L gi+1y
=L+

4 C2ko(1-0) Z ®a (2"‘)(2:21(1 ) sup  inf [u_p]a,a;Qzj(to,X0)+||u||Loo)' (3-26)
Pyl (t0,x0)€Q!+1 PEPI

Then we choose kg and / sufficiently large, and apply Lemma 2.1(iii) to obtain

hj(-e) inf Ty — . |
Z (70, xo)pte PEPl[ p]a’a’Qz—J (t0,x0)

1) 00
l _ _
Z Z J(l —a) sup inf [u _ ]a,a;QZ,j (to.x0) + C2(l+k0)(1 Ot)”u”%’a +C Z a)f(z k)’

(to,x0)€Q!+1 PEP1 k=1
and thus,
o0
Z 2/ sup inf [u — P]a,a;Qz—/ (t0.x0) = C“””%,a +C Z wf(z_k)’ (3-27)
(t0.x0)eQ! PEM1 k=1
from which (3-20) follows. The proposition is proved. O

Proof of Theorem 1.1. We use the localization argument to prove Theorem 1.1.
Without loss of generality, we assume the equation holds in O3. We divide the proof into three steps.
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Step 1: For k = 1,2, ..., define Q% := Qi_5—«k. Letng € C(‘)’O(Qk+3) be a sequence of nonnegative
smooth cutoff functions satisfying g = 1in Q%*2, |nx| < 1in QK+3, |8 Ding |, < C250+D for
each i, j > 0. Set v := ung € C°% and notice that in Q% *1,

sV = N Oru + 0ynpu = ﬂifeli(’?kLﬂ“ +nibgDu + ny fp + d¢npu)
= ,ging(Lﬂvk + bﬂka —bﬂuDT]k + hkﬂ + T]kfﬂ + 0/npt),
€
where

(2, x,y)ap(t,x,y)

pare

hig =k Lgu — Lgvg =
R4

and
Ext.x,y)=u(t,x+ y) (e (t.x +y) —ni(t.x)) —y- Dy (t, x)u(t, xX)(Xo=1XB, + Xo>1)
=u(t,x + y)(r(t, x + y) —nr(t,x)) since Dng =0 in Qk+1.

We will apply Proposition 3.3 to the equation of vy in Qk *1 and obtain corresponding estimates for vy
in Q.

Obviously, in Q**! we have Nk /g = g, bpuDng =0, and d;ngu = 0. Thus, we only need to
estimate the modulus of continuity of /15 in Qk +1,

Step 2: For (7, x) € Q%1 and | y| < 273, we have

(2, x,y)=0.
Also,
|5 (2., )| = [ult, x + p) (i (@, x + y) — e (2, X))
- {2a)u(|y|) + 2|u(z, x)| when |y| =1,
—\C2%|u(t, x + y)||y] when27%73 < |y < 1.
For (¢, x), (,x") € Qk T1, by the triangle inequality,

|hip(t, x) — hyp(t', x")|

- / |Gk (1. x, y) =&k (1. X" y))ap(t, x, p)| N 1§ (7. X" y)(ap(t, x, y) —apg(t’, x', y))| dy
~ JRra |y|d+a |y|d+a
=I1+1L (3-28)
By the estimates of |&; (¢, x, y)| above, we have
o0
I < C(z"“’*” lullzoacon + 2‘f”wu(zf))wa(max{|x —¥le=r7h. (3-29)

j=0

where C depends on d, o, and A. For I, by the fundamental theorem of calculus,

1
Ee(t.x,y) =& (' x" y) = y'/ (u(t.x + y)Dng(t. x + sy) —u(t'.x" + y) D (¢, x" + 53)) ds.
0
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When 27%=3 < |y| < 2, similar to the estimate of £ (7, x, ), it follows that
|6k (t, X, p) = E (£, X', )

< Clyl(2Xoumax{lx —x'|. |t =117 }) + 22K ||ull L 0oy (I — X' + |t —£'])).  (3-30)
When |y| > 2, we have

(1 x, ) = £ (X p)| = (e x + p) —u(@ X'+ )| < wu(max{]x x|t —'|7}),
which implies
1< C2X0 Doy maxtl .|t =117 3) + C2CH ul L gy (1 x| +-1i =],
Therefore,
i (t, %) = g (¢, x')| < op(max{x — x|, |t =2'|7 ),
where

(o,]
on(r) =€ (Ol 0+ 327704 1)
j=0

+C25O D, (1) + C2XOD w00 (r +1%)  (3-31)
is a Dini function.

Step 3: In this last step, we only present the detailed proof for o € (1, 2). We omit the details for the proof
of the case o € (0, 1], since it is almost the same as and actually even simpler than the case o € (1, 2).
We apply Proposition 3.3, together with a scaling and covering argument, to vy to obtain

1900kl Lo r) + V]G o + [ka]ﬁ%l;Qk

o0
< C2 g llLoy + C2HO™ ol o + C D (a7 + 0 (277))

o
o

j=1
< C2XOu L (5) + Co2* O ule 4: 0n43
w . . CXD . .
+C Y 27w, (@) +C Y M w7 + 027,
j=0 j=0

where C and Cy depend on d, A, A, 0, Ny, wp, and w,, but are independent of k. Since n; =1 in Qk, it
follows that

[[07u ||Loo(Qk)+[u]);;Qk +[DM]Z%I;QI¢

< C22OMulL (00 +Co2 ™l g 01+

o0 o0
+C Y 2770, +C Y (2O Ve, 27 )+ 277)). (3-32)
j=0 j=0
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By the interpolation inequality, for any ¢ € (0, 1),

[ule o:0n+3 < e(llOrull L (r+3) + Uy, gr+s) + Ce™ 7~ lull Lo (03)- (3-33)
Recall that « < (6 — 1)/2 and thus,
o o—1 1
< < —=.
o—a o+1 2

Combining (3-32) and (3-33) with & = C; 1273k~16, we obtain
19rull Lo cry + [l o + [Du]?%l;Qk
<27, s + 19eull o gty + [Du]’(%l;QkH) +C2%lull Lo 03
+C i 277%0,(27) + C i(zkwmwu(z—f) +wp(277)).
Jj=0 j=0
Then we multiply 2~ to both sides of the above inequality and get
2710 ull oo ok + [T or + [Du]i%l;Qk)

< 2_5(k+3)—1 (||8t””Loo(Qk+3) + [u]i;Qk+3 + [Du]tcr;l;Qk—i-S)
00

+C2 Ml Log(oy + C27F Y Q7 wu(2)) + 0,277 + wp (27)).
=0
We sum up the both sides of the above inequality and obtain
o0

Z 2_Sk(”atu||LOO(Q1<) + [“]);;Qk + [Du]ff;l;Qk)
k=1 7
1

=

|

o0
Y 2 UBeull by + [T gk + [Du]f%l;Qk)
k=4

o0
+ CllullLoion + € Y Q7 0u(2) + 04 (277) + wp(277)).
j=0
which further implies

o0

2 27 el vy + Ty g + (DUl 1)

k=1 o0

< CllullLaigs) +CY_ Q77 0u(2) + 0u277) + wp(277)),
j=0

where C depends on d, A, A, 0, wp, Ny, and w,. By applying this estimate to u — u(0, 0), we obtain

o0
1801l Loy + [Ty, gu +[Dully 5o < C Y7700 +0u27) +0r@77).  (3-34)
o j=0

This proves (1-4).
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Finally, since [|vy|| a o is bounded by the right-hand side of (3-34), from (3-19), we see that

00
2](0—0l) sup inf [Ul_p]& 0. )SC
]go (t0,x0)€Q! DPEP o % ¢r—j o,X0

for some large /. This and (3-18) with u replaced by vy and fg replaced by /1411 fg+03:n1u—bguDn,y
give

o0
Z 7 (i +ko)(o—a) sup pleng [v; — p]%’“;Qz—f—ko (t0,%0)
j=k1+1 (t0,x0)€QF1 !

oo
< C27Fo% 4 020 @) N (0, (27) + 0a (27 + 0k 27T) + wp(27) +2779).
j=ki

Here we also used (3-31) with k = 1. Therefore, for any small ¢ > 0, we can find k sufficiently large,
then k sufficiently large, depending only on C, o, Ny, &, wf, s, @y, wp, and wy, such that

o0
Z 7 +ko)(o—a) sup pleng [vi — p]%,a;QZ_j_k0 (to,x0) < &
j=k1+1 (t0,x0)€QF1 !

which, together with the fact that vi =« in Q 1 and the proof of Lemma 2.1(i1), indicates that

sup — ([ulg, +[Duly_;. )—>0 asr—0
(tO,XO)EQl/z U’Qr(IO’XO) Tl’Qr(t()’xO)

with a decay rate depending only on d, A, Ny, A, wg, wf, wp, wy, and o. Hence, the proof of the case
when o € (1, 2) is completed. O
4. Schauder estimates for equations with drifts

We now are going to prove Theorems 1.3 and 1.4. Here, the main difference from the theorems in [Dong
and Zhang 2016b] is that our equation may have a drift, especially for o = 1.
We first prove a weaker version of Theorem 1.3.

Proposition 4.1. Suppose (1-1) is satisfied in Q,. Then under the conditions of Theorem 1.3, for any
y € (0, min{&, 2 — 0'}) with & being the one in Proposition 3.1, and any a € (y, min{&, 2 — o'}), we have

[u]l-i-%,d-i—)/;Ql/z = C(”u”%,a + Cf)?
where C > 0 is a constant depending only on d, y,a, o, A, A, Ny, and Cj,.

Proof. The proof is very similar to that of Propositions 3.2, 3.3, and 3.4. We fix an o € (y, &).

Case 1: o € (0,1). We start from (3-9). Let Q' and £, be as in the proof of Proposition 3.2. Multiplying
2k+k0)¥ 1o both sides of (3-9) and making use of the Holder continuity of @ and £, we have for all / > £,
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and k >1+1,

plktko)oty—a) o inf [u — ple 4-
(toyxo)P;Ql Pepz[ p]“’a’QZ_k_kO (t0,%0)

k
< Cpk+ko)(y—a) sup k=)o inf

[u—ple a;(to—2"%%tg)x B, i _i (
.05 ; j—k (x0)
(to,x0)€Q’ j—o PEP: 7 2

+ C 2 k+ko)(y—a) [u]

00
4 Czko(o—i—y—a)[cf + sup hilo—a) ;¢ [u —p]g’a;Qz_j (to.x0) T ||M||Lw]-
(t03x0)€Ql+lj=0 DEP; o

Taking the supremum in k > £y + 1 and using the fact that y < «, we have

sup  2k@FY=a) gy inf [1 — P]%,a;Qz—k (t0,x0)
k=Lo+ko+1 (t9.x0)eQ! PPt

< C2kor=a) gyp pke+y—a) gyp inf [u— ple a:0, 4 (xo)
k>0 (t0,x0)€Q! PEP:

+ (/’2(504-/604-1)()/—00[u]E o
m .
+ C2kolo+y—a) [Cf + sup hilo—a) ¢ [u— P]%,a;er (to,x0) T ”u”Loo]

(t0.x0)€Q!+1 i g PPt

By taking kg large, / = £y, using (3-10), and noticing that

sup rk(o+y—a) sup inf [u _p]%’“;Qz—k(t - = C2(€°+k0)("+1’_0‘)[u]%,a,
0<k=<lo+ko (to,x0)eQ! PEP: 0+X0
we have
sup 2KV qup inf [u— ple g,y (o.x0) < CLCr F Il 2 o).
k=0 (t0.x0)€Q1/2 PEPt
Since
(]2 gy < Csup2k@+r=o)  qp inf [ — ple 4.0\ (to.x0) + Clule o,
0 07012 k=0 (to.x0)€Q1/2 PEP1 7 i Qamk (f0-x0) o
we obtain

hit2.04y:01, = Cllullz o +Cp)-

Case 2: o € (1,2). We start from (3-17). Let Q' be as in the proof of Proposition 3.3. Multiplying
2(k+ko)¥ 1o both sides of (3-17) and making use of the Holder continuity of a, b, and £, we have for all
I>1landk >1+1,
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plcrkooty=e) gy inf [u—ple
(to, X())P;Ql pePl[ p] o0 5—k—kq (to,x0)
k
< C2lktko)y—a)  qyp Zz(k D% inf [u— p]a’a (fg—2-k5, 1) B

c »i—k (x0)
(t0.x0)€Q! j —o PEP1

+ 2T a 4 COEHIT = Dyl o1

+C2k0(0+y—a) |:Cf+”Du||Loo(Ql+l)+ sup 221(0 @) inf [u p]f a;Q,—j (to, X())+||u||Loo:|
(t0,x0)€Q!+! i PEPI

Note that this & can be chosen very small, at least strictly smaller than o — 1. Taking the supremum in
k > 2 and using the fact that y < o, we have

sup 2KO@FY—®) g inf [u—ple o4:0,  (t9,x0)
k>ko+2 (to.x0)eQ! PE1

< Czko()/ (1) sup 2k(0+y (Z) Sup lnf [u p]aga QZ k (XO)

k=0 (to,x0)eQ! PET1
+C2(k0+2)(7—0!)[u]%,a+C2(2+k0)(y—06)+k00[Du]%,a;Ql_H
00
+C2koloty—a) |:Cf+”Du||LOO(QI+1)+ sup 221(" @ inf [u— Ple w0, ; (o, x0)+||u||Loo:|
(to,xo)te'Hj —0 DPEP

By taking kg large, / = 1, using (3-19) and (2-4), and noticing that

sup 2k(a+y ) sup inf [M _p]g o Q2 ko = < C2(1+k0)(a+y Ol)[u]a
0=<k=1+ko (to,x0)€Q! PEP 0-X0
we have
sup 2KV qup inf [u—ple 4ig . toure) < CLCr + llulle o]
k>0 (to,x0)€Q1/2 PEPI
Since

u < C sup 2k(etr—o) o inf [u — +Cu, ,
[ ]1“{‘ ,0+Y; Ql/2 k>I()) (tO xo)ng/z pepl[ p]o'ﬂa Q2 k([O,XO) [ ] o4

we obtain

[u]1+%,a+y;Q1/2 = C(”u”%’“ +Cp)-

Case 3: o0 = 1. We start from (3-25). Multiplying 2k+k0)¥ 1o both sides of (3-25) and making use of
the Holder continuity of @, b, f, we have forall/ > 1 and k >/ + 1,
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2k AH+Y=0)  quninf [u—ply.a:o
(to-x0)eQ! PP 2

k

k—j
sup D 257 inf [u=ply asrg—2-+ t0)x By (x0)
(t()axo)tej:O p !

—k—kq (tg-x0)

< ¢ 2lketko) (y—)

o0
+C2ko(Fy—a) |:Cf+||Du||LOO(Q1+1)+Z 2/0=0) qup 1€rg [”_p]z,Qz_,- (t03x0)+||u||Loo:|
j=0 (to,x0)eQ!+1 PE7x

+ C2k+ko)(y—a) [t]a

O

Taking the supremum in & > 2 and using the fact that y < o, we have

k(1+y—a) .
sup 2 su inf [u— .
kzkop+2 (to,xo)pte P€7’1[ p]a’a’Qz_k“U'xO)
< C2ko=Dr—a) gy k(t+y—a) ¢, inf [u— . )
B kzl?) (to,xo)p€Q1 P€7’1[ p]a’a’Qz_k(’O'XO)
o0
+C2ol+r=e) [Cf+||Du||Loo eyt Y2707 g inf fu—plE 5 +||u||Loo}
w J;O (to,x0)€Q!+1 PEPx Q05— (f0,x0)
+C2k0(y_a)[u]a,a~
By taking kg large, / = 1, using (3-27), and noticing that
su pk(ty—a) o inf [u — . < C2koUty=adpyy
OSkS/Ic)()—H (to,xO)P;Q’ pePl[ p]“:“’Qz—k(to.xo) [4]or,x
we have
sup 2077 sup inf [u— plawio, s, . = CICr + llullaal.
k>0 (t0.x0)€Q! PEM1 ST
Since

Duly, . +[0:u]y < C sup 2kU+r—0 g inf [u — : + Clula .o
[ ]V,V,Ql/z [0¢ ]J/,V,Ql/z kzl()) (to,xo)ele/z pePl[ p]“’o‘=Q2—/<(z0.x0) [t]a,o

we obtain

[Du]%l’;Ql/z + [8tu]y,y;Q1/2 = C[Cf + ”u”oe,ot]- O

Proof of Theorem 1.3. The proof is the same as that of Theorem 1.1 using localizations. We sketch the
proof here. We use the same notation as in the proof of Theorem 1.1. Without loss of generality, we
assume (1-1) holds in Q3.

Let ng € C0°°(Qk +3) be a sequence of nonnegative smooth cutoff functions satisfying = 1 in Q**2,
In] < 1in QK*3, |87 Ding||L.. < C2KG+D) for each i, j > 0. Set vy := uny € C'*o77 and notice
that in Q1,

drvg = gni(Lka + bgDvg —bguDng + hyp + ni fp + dengu),
€
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where
Ex(t, x, y)ap(t,x,y)
R4 |)’|dJrl ’

hip(t,x) =
and
Ek(t.x,y) = u(t. x + y) (et x + ) =i (2, %)) —u(t, x)y - Dnge(t, X)(Xo=1XB, + Xo>1)
=u(t,x+ )i, x +y)—nr(t,x)) since Dy =0 in Qk+1.

We will apply Proposition 4.1 to the equation of vy in Qk *1 and obtain corresponding estimates for vy
in OX.

Obviously, in Qk"'1 we have 1y fg = fg, buDny =0, and 9;n,u = 0. Thus, we only need to estimate
the modulus of continuity of /g in Qk +1. Since

Ex(t,x,y) i=u(t,x +y)(e (@, x + y) —ne (2, x)),

which is the same as in Theorem 1.1, we also have (3-31) here. Therefore,

o0
kgl ;o1 =C (2k(0+1>k lullLoion+ D 27wy (2])) +czk<0+1>[u]g,y+czk(0+2) )l L os0s)-
=0
The rest is almost the same as (actually much simpler than) the proof of Theorem 1.1, by using
Proposition 4.1 (recalling y < «), and we omit the details. O

In the following, we prove Theorem 1.4 using Theorem 1.3 and difference quotients.

Proof of Theorem 1.4. We only provide the proof for o 4+ y > 2. We know from Theorem 1.3 that there
exists yo such that o + y < 2 is not an integer, and the theorem holds for 0 < y < y,. Below we will
prove the theorem for all y € (yq, ) using difference quotients.

We suppose (1-7) holds in Q4. We will consider the difference quotients in x first. For / € (0, %),
eeS4 1 et

A _u(t,x+he)—u(t, x) A S, x+he)— f(t,x)
wi(t, x) = LY —Yo . S x) = hY—Yo ’
and (t.x + he, ) —a(t, x, y) b(t,x +he) —b(t, x)
A _a(t,x e,y)—alt,x,y h _ b, x e)—b(t,x
a (t,x,y) — hy_yo ’ b (tvx) - hy_yo °

Then u” satisfies

du(t,x) = Lyu" +b(t,x + he)Du" + [+ b"Du+g in 0Oy,
where

Su(t,x, y)a(t,x + he, y) Su(t,x, y)a(t,x, y)
Lyu= dy, = dy
Rd |pld+e R |pld+e

Applying the result for y = y gives
[uh]l-l-?,aﬂfo;Qsm = C||uh||%0,y0 T C[fh T thu + g]’;TO’Vo;Ql'
It follows from direct calculations that

[g]%o,yo;Ql = C[u]l‘f‘%o,a-i-y();Qs/zt + C”u”%(),yo'
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Y
Applying the C 1+3 .9+ egtimate as mentioned at the beginning of this proof, we have

[g]’;—",yo;Ql < Cllu| VO + C[f]* »¥0;Q2°
Similarly, we have

(b Dulso .0, = ClIDUI 0, = Cllulla, +CLA

Y0;Q1 »¥0;Q2°

Therefore,
[uh]1+%0,0+1/0;Q3/4 = C”u”%,)’ + C[f]%,V;Qz'

Note that we assumed that 0 + y > 2 and thus, 0 > 1. Also 1 <o + yp < 2. Then we have

[(Du) ]U+J/0 ;034 = C||U||V + C[f]g,y;sz

that is,

|Du(t, x 4+ 2he) —2Du(t, x + he) + Du(t, x)|
oty < Cllullz,, +Clflz 4.0,

for all (¢,x) € Q1 1 and h < 55. Making use of (2-1) and sending j — oo there, we have

o0
|Du(t, x + he) — Du(t, x) —hD*u(t, x)-e| < ChFY~1 )" 2—k<0+y—2)(||u||§,y +1f12.:0,)
k=1
< Clully, + /12 ;0,007
from which we have

[l54y:0,/, = Cllullyy, +CLf1x .0, (4-1)
Similarly, we can use the difference quotients in ¢. For s € (O, 10) let
u(t,x)—u(t—s,x)
ui(t,x) = 7o . (4-2)

S o

By similar arguments, we have

[t* i+y° 01, < Cllully,, +Clf12 5.0,
that is
(@)l g, , = Cllully y +CLf 12 20,

The same arguments as the above (noticing o > y) will lead to
Wy v.0,,, = Clltlly +CLA Nz yi0n
This estimate, together with (4-1), implies

[“]1+%,G+V;Q1/2 = C“u”%)’ + C[f]%’V;QT

We remark that actually the proof of the other situation o + ¢ € (0, 1) U (1, 2) is exactly the same as
above. O
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5. Linear parabolic equations with measurable coefficient in ¢

We now consider the linear equation (1-7), where K, b, and f are Dini continuous in x but only measurable
in the time variable . We first need a proposition for the case that K does not depend on x, and b = 0.

Proposition 5.1. Leto €(0,2) and 0 <A < A. Assume K does not depend on x,and b =0. Let o« € (0, 1)
such that o + « is not an integer. Suppose u € CZ+T4(Q1) N Co (=29, 0) x R¥) is a solution of (1-7)
in Q1. Then,

Ul 46:0,,, = C Z 277M; + Clf g,
j=1
where

t,x)—u(t,x'
) = wp w0 —u )]

_ /|
(#,%),(t,x")€(—1,0)x B, ; |x — x|
0<|x—x'|<2

and C > 0 is a constant depending only on d, o, A, A, and Ny, and is uniformly bounded as ¢ — 2~

Proof. We only prove the case that o + o > 2 as before. Let n be a cut-off function such that n € C °°(Q )
and n =1 in Q% Let w(t,x) = u(t, x) —u(z,0), f(t x) = f(t,x)— f(¢,0) and v = nw. Then v
satisfies

vi=Lv+h+nw+nf—ng() in(=2°,0)x RY,
where
h=nLw—L(nw) = /R((n(t, x) =t x + y)w(t.x +y)+ yT Dy(t. x)w(t, x))K(t, y) dy
and

g(t) = (Lu)(t.0).

By Theorem 4 in [Mikulevi¢ius and Pragarauskas 2014], we have

W3 q < Cllh+niw+nf —ng@)]3.
From (3.18) and (3.23) in [Dong and Zhang 2016a], we have

11X < CAw I,y gy + VLS

05;Q15/16) = C(||u||(’;

Vul¥

;(—1,0)xR4 +[Vuly, le/le)

It is clear that
Ing@lx < CUD* ullLo(r/5) + 1 PUN Lo (0/5) + Nl (1.0)xR4Y)-
InflIy < ClfTa, 05,4

Therefore, we have

[u ]g+a Q12 = C(”D u||Loo(Q7/8) + ||Du||Loo(Q7/8) + [v”]a ;015/16 + ”u”()xc;(—l,o)de + [f]z;Q3/4)'

The same interpolation arguments of the proof of Theorem 1.1 in [Dong and Zhang 2016b] lead to

[ ]o'+a Q12 — C(”u”X( 1,0)xR4 + [j]‘x Q3/4
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Then as in the proof of Proposition 3.1, see also [Dong and Zhang 2016b, Corollary 4.6], applying this
estimate to the equation of v := 7(u(t, x) — u(¢,0)), where 7] € C(‘)’O(Q%) satisfying 7 = 1 in Q%, we
have the desired estimates for [u]} 5:01/2" O

Proposition 5.2. Suppose (1-7) is satisfied in Q5. Then under the conditions of Theorem 1.5, we have

o0
1.0, <Cluly +C Y wp@™), (5-1)
k=1

where C > 0 is a constant depending only on d, A, A, wq, wp, Ny and o.

Proof. We will consider three cases separately.

Case 1: 0 € (0,1). For k € N, let v be the solution of

{811) =L 0)v+ f(t,0) forx € B,—«,and almost every ¢ € (=27°k 0], (52)

v=u in ((—27%%,0) x BS_, ) U ({r=—27} x B, ).

We sketch the proof of the existence of such v as follows. Let K¢(z, 0, y) and f%(¢, 0) be the mollifications
of K(¢,0, y) and f(z,0) in ¢. Then there exists v® satisfying

{8,1}8 = Lé(t,0)v° + f4(z,0) in Q,—x,

Ve =u in (=27%9,0)x BS_, ) U ({t=—27K} x By). (5-3)

Since this equation is uniformly elliptic, we have the global uniform Holder estimate of v%, which is
independent of . Thus, there exists a subsequence converging locally uniformly to a global Holder
continuous function v. On the other hand, by Proposition 5.1, we can reselect a subsequence such that for
almost every time, they converge to v locally uniformly in CZ+%(B,—«). Since we have from (5-3) that
for all 7 € (—27%9, 0],

{vs(l,x) = u(—27k7 x) +f12,k(, Lé(z,0)v (1, x)dt + fisza fé(z,0)dt in Q,-«,

Ve =u in (—27%9,0) x BS_,) U ({r=—27%9} x By-x),

we can send ¢ — 0, using the dominated convergence theorem, to obtain
v(t,x) = u(=27%% x) + fiz_kg L(z,0)v(zr,x)dt + fiZ—kU f(z,0)dt in Q,«,
v=u in (=27%9,0)x BS_, ) U ({t=—27%} x B, ).

This proves (5-2). Moreover, we have from the estimates of v® in Proposition 5.1 by sending ¢ — 0, that

o0
[]X <Y 2k Dopg 4 cakofuyy (5-4)

a+0;0, k-1 — a0,k
ji=1

where « € (0, 1) satisfying 0 +« < 1 and

|u(t, x) —u(t, x")|
|x —x/|*

M; = sup
(t.%),(t,x")€(=27%% 0)x B, ;
0<|x—x'|<27F+!
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Let ko > 1 be an integer to be specified. From (5-4), we have

k
Va0, sy = Co~ktkoo N " pk=Do gy 4 comktkoopx C2_k°”[v]§;Q2_k. (5-5)
ji=1

Let w := u — v which satisfies
{Btw =Lt 0w+ Cy in Oy,
w=0 in (—=27%9,0)x BS_, ) U ({t=—2"%} x B, ),
where
Cr(t,x)= f(t,x)— f(t,0)+ (L(t,x)— L(z,0))u.

It is easily seen that
e .
ICk Loty ) S @r@7F) + Cwa@—k)( sup Y YOO e ||u||LOO).
(t0,x0)€Qs—k j—¢ >
Then by the Holder estimate [Dong and Zhang 2016b, Lemma 2.5], we have

[w]%,(x;QZ_k f C2—k(U—Ol)Ck

o0
5Cz—kw—a)[wf(z‘k)wa(z‘k)( sup 22’(“_“)[”]2?@2_,-(zo,xo)+||”||Loo)]'

(t0,x0)€Q5—k j—q

(5-6)
Combining (5-5) and (5-6) yields
k+k —
et a)[u]E;Qz—k—ko
k
—(k+ko) k—j)
<C2 o) Z olk—j a[u]z;(_z_,m’ 0)x B,
j=1
+ Com ROy - CoTRoe KOO e, T CEOOT P, @7 (57)
o0
ko(o—a) —k Jjlo—a)p, 1x
£ 00,00 s SOy )
(t0,x0)€Q5—k j—9
Let Ql, I =14p,Lg+1,...,be those in the proof of Proposition 3.2. By translation of the coordinates,

from (5-7) we have for [ > {g, k> 1+ 1,

o (k+ko)(o—a) sup [l
(to,x0)€Q! a’QZ—k—kO (to,x0)
k
—(k+ko)a k—j)oy, 1x ko
<C2 (20 )SCE)P;szZ;)z [u]a;(to—z—kcr,to)Xsz_k (x0)+C2 [u]a

o0

+C2k0(0—0[) |:C()f(2_k)+6l)a(2_k)( Sup sz(ﬁ_a)[u]E;Qz_j (to,x0)+||u||Lm)]' (5-8)
(to,x0)€Q!'+! i —
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Then we take the sum (5-8)ink =/+ 1,/ +2,... to obtain

00
k+k -
Z alkrko)oe) Sup [u]z§Q2—k—ko(t09x0)
k=141 (t0,x0)€Q!
) k
—(k+ko) k—j)
=C Z 2 % sup 22 ]a[u]z;(to—Z*’“’,to)Xsz—k(Xo)
k=I+1 (t0,x0)€Q" j—9

oo
+ Com koo pr g cokoleme) N (27F)

k=I+1
[ele] o0 .
+ C2kolo—a) Z Wq (2_k) (Z 2Jo Sup [u]E;Qz—j (to,x0) T o ”LOO)'
k=1+1 j=0 to.x0) Q!

As before, by switching the order of summations and then replacing k£ by k 4 j, the first term on the
right-hand side is bounded by

00
C2—koa Z zk(a—a) sup

X
[u]C‘;Qz—k (#0,x0)"

k=0 (t0,x0)€Q!
With the above inequality, we have
00
k+ko)(o—
Z 2( 0)(c—a) sup [u]z§Q2—lc—lc0(f0,x0)
k=141 (to,x0)€Q!
00 00
<€ 3 20T sup (g, gy T OO + €20 D 0p276)
k=0 (t0,x0)€Q! k=Il+1
00 o
020D Y 0,00 ( LT s Wi g )
k=I+1 =0 (t0,x0)€Q! !

The bound above, together with the obvious inequality

l+kg
> YT sup [l g = C2UTOTO,
Jj=0 (t0,x0)€ Q! IR

implies

w .

Zz](a—a) sup [u]z;QZ—j(IO,XO)

j=0 (to,x0)€Q!

o0
< C2 ko Z 2Jj(o—) sup  [u]

X
a;Q,—j (t0,x0)
j=0 (to,x0)€ Q! >

oo
+ Co R 1 Co R0y 4 cokolem0 H g (27K)
k=Il+1

o0 oo
+ 2ol 37 wa(z_k)(z 2/ sup [”]ﬁ;Qz_,-(to,xO)Jf””“Loo)'
k=I+1 j=0 (t0,x0)€Q!+1
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By first choosing k¢ sufficiently large and then ¢, sufficiently large (recalling / > £;), we get

sz(f’ ) sup [U]a 0, (to,x0)

(to,x0)€Q!

oo
1 i(o— - -
zZz’(" O s 8, T CXHOIIE €YD 07,
j=0 to,Xx0)€ k=1
This implies

o0

—k

Zz“” D s [Wlig, oy = Cllulls +€ 3007,
(t0,x0)€Q k=1

which together with Lemma 2.1(i) gives (5-1).
Case 2: 0 € (1,2). For k € N, let vps be the solution of

drvpr = L(t,0)vpr + f(2,0) +b(t,0)Du(t,0) —d; po  in Oy,
UM = gMm in (=27%9,0)x BS_, ) U ({t=—27%} x B,),

where M > 2|u — P0||LOO(Q27k) is a constant to be specified later,
gy = max(min(u — po, M), —M),

and po = po(?, x) is the first-order Taylor’s expansion of u@™) in x at (t,0), and @™ is the mollification
of u in the x-variable only:

w1, x) = / u(t.x — R)E(y) dy
Rd

with { € C$°(B)) being a radial nonnegative function with unit integral.
By Proposition 5.1, we have

o0
[UM]z+a;Q2—k—1 =C Z 2(k_j)an + C2k0[vM]§;Q2_k ’
j=1
where « € (0, min{2 — o, (6 —1)/2}) and

(2, x) = po(t, x) —ut, x") + po(t. )|

M; = sup X[

(t,x),(t,x") (=275 0)x B, j _i
0<|x—x'|<2—k+1

From Lemma 2.4 with o € (1, 2), it follows that for j > k, we have

C[U]a( 2— /‘UO)XR‘]’

and thus,

[mlgio:0, 4 =€ 526D OOl
j=1

k
<C Y 2% D7 MG 4+ Clul? (2-ko 0yxd F C2% o], 0 s (5-9)
j=1
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From (5-9), and the mean value formula (recalling that « < 2 — o),
k
—(k+ko) (o + k—j
lvar — P ”Loo(Qz—k—kO) < ¢ ktko)(ote) Z 7 J)an
j=1

—(k+ko)(o+a) ka—ko(o+a)
+C2 oaa[u]z a—Kolo Ol[

;(—27k9 0)x R4 +C2 UM]z?Qz—k’

where p; is the first-order Taylor’s expansion of vps in x at (¢, 0). The above inequality, (5-9), and the
interpolation inequality imply

X
[UM - pl]a;Qz_k_kO

k
< C2—(k+k0)0 Z Z(k—])UMj + Cz—(k+k0)0[u]z;(_2_ko, 0)xRd + CZ_kOG[UM]z;QZ_k ) (5_10)
j=1
Next wps := gy — var, which equals u — po —vps in Q,—«, satisfies
drwpr = L(¢,0)wpr +hpr + Cr in Qy—k,
wpr =0 in ((—=27%9,0)x BS_, ) U ({r=—2"%} x B, ),
where
hae == L(2,0)(u — po — gm)
and
Cr=f—f(t,0)+bDu—>b(t,0)Du(t,0)+ (L — L(¢,0))u.
It follows easily that
Gkl =027 + 0 @) DullL (0,0 + 1027 Dl
et .
+ Cwa(275) sup Z 2/(0=) sup  [u(t,-)— Pt,xo]E;Bz_j (x0)
(t0,x0)€Q5—k j—0 te(to—2779 1)
+ Coa @)1 DUl Lo, ) + ]l Loo)-
where p; x, = Pr,x,(X) is the first-order Taylor’s expansion of u with respect to x at (¢, x¢). From
Lemma 2.3, we obtain
(Ckl = w27 + 0 @) DullL o0, + 10l 27Dl
w .
+ Cwa(275) sup 2/ qup inf [u(t,-)—pl.p
(to,xo)eQz_k ;) te(to—2-79ty) DEPx o DyH—j (x0)

+ Cwa ) (| Dul L0, ) + 14llLo)-

By the dominated convergence theorem, it is easy to see that

1l Lo, i) = O as M — co.
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Thus, similar to (3-6), choosing M sufficiently large so that

1Ml Loo(@,—i) = 7Ck.

we have

[wM]%aa;Qz—k

<2k [wf Q27 H@p @)+ 0a @D Dullz (0, 0 +27Dulyg

o0
+wa(2_k)( sup 2/ qup inf [u(t,")—pls.p . +||u||LOO)i|- (5-11)
(tO,XO)egz—kj;o te(to—2—i0,19) PEPx @3B, (x0)
From Lemma 2.4 (more precisely, its proof)
M;<C su inf [u(t,-)—pli.p . . 5-12
! tG(—ZB<‘7, 0) pGPx[ ®) p]“’Bzf*"' 6-12)
From the triangle inequality and Lemma 2.4 with j = 0,
[UM]E;QZ_,( = [wM]z;QZ—k + [l/l - pO]z;Qz_k
< [wM]ZCt;QZ—k +C sup inf [u(z,-) —p]fl;Bz_k.

te(—2-ko,0) PEPx

For/=1,2,...,let Ql = Q{_,—. Combining (5-10), (5-11), and (5-12), similar to (5-8), we then get

o (k+ko)(o—a) sup sup inf [u(t,-) — pI¥ B, kg 410 ()

(t0,%0)€Q! 1e(tg—2~ k0 TK)0, 1) PEPx

k+ko)(o—
< plktko)(o—a) sup  [u— po— pl]E5Q2—<ko+k>(’0’x0)

(t0,x0)€ Q!
k .
=t aup 3 T2EENT sup il [u(t) = plp,,
(to,x0)€Q" j—1 te(to—275%% 1) F="x
+CoT O+ sup  2TRHRETIDUT ) )
(t0,x0)€Q!
+ C2fm) [wf(z—k) + (@527 + 0a @D Dull L, o1+
o0
—k j(0—a) : X
+ wq (2 )( 27 sup sup inf [u(t,-)—pl,.p . + ”u”Loo)]‘
Z(:) (t0,x0)€QIH1 te(to—2-719) PEPx %8y (o)
Summing the above inequality in k =7+ 1,/ 42, ... as before, we obtain
o0
pkrkoro=a) gy sup inf [u(z,-)— pI
) ’B —(
k=21-:‘r1 (tO:XO)te 16(10—2_(k0+k)0,t()) DPEPx o 2 (1\0+k)(X0)
o0
—koa jlo—a) . N 1X
<C27"% Z 2 sup sup inf [u(z,-) p]a;Bz_j (xo)

j=0 (to,x0)€QIH1 te(to—2-719) PEPx
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o0
+ OO 4 €20 3 27w [Duliip
k=I+1 (to,x0)€Q!

o0
+c2k0<0—“>[ > (0 @7F) + (@ 27F) + wa @) IDul L gi+1))
k=I+1
" Z @2 k)(”u”L‘”Jrsz(a @ sup sup inf [u(t.) = plo:p, j(Xo)):|’
k=I1+1 (t0,x0)€Q! 1 1€(tg—271%19) PEPx
(5-13)
and
o0
21— gup sup inf [u(t,-)—pls.p .
jg(:) (to,x0)E€Q! te(to—2-19 1) DPEPx a;B,—j (x0)
< Cz_k()a 2](0 LY) Sup Sup lnf [u([ ) p] B
]ZO (to,x0)€Q! 1 te(to—2-10,19) PE @3B, (x0)
+C2ko(6 a)”u”L +C2(l+k0)(a a)[u]x+C2k()(a o)— la[Du]a o+
o0
+ 2k N (0, 27F) + (0p27F) + 0a 7N | Dl gr1))
k=I+1
+C2lolme Z ©a (2_k)22’ 7= sup sup - inf [u(t.) = Plyp, (xo):
k=I+1 j=0 (t0,x0)€Q!H1 te(to—2-719) PEPx

By choosing k( and / sufficiently large, and using (2-4) and interpolation inequalities (recalling that
o < (0 —1)/2), we obtain

yjlo—a) sup sup inf [u(t,-)— pls.p .
Z (t0,x0)€Q! te(to—27791y) PEPx o;B,_j (xo)

o0
1 .
<2 ¥ il gy sup inf [u(r,-)— pI%. g

4 ; (to,x0)€Q! 1 te(to—2—791y) P EPx o;B,_j (xo)

o0
+ C2%o D=0y 1% €N " wp27F).
k=1
Therefore,

o
Z 2/C0 sup swp it [u(t) = Plop, ey = Cllulla +C Y 0r @7, (-14)
(to,x0)€Q! te(to—277%19) PE"~ k=1
which together with Lemma 2.1(ii) (actually the proof of it) gives (5-1).
Case3: 0 = 1. Set

Bo(t) = /Ob(s,O) ds
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and we define

(1, x) = u(t,x + Bo(t)), fa(t,x) = fa(t,x + Bo(t)), and b(t,x) = b(t,x + Bo(t)).
It is easy to see that in Qg for some § > 0,

3:01(t, x) = (D;u)(t, x + Bo(t)) — b(t,0)Vu(t, x + Bo(t))
= Lgii+ fg+ (b—b(1,0))Va, (5-15)

where L is the operator with kernel a(z, x + By (), y)|y|_d_". For (t,x) € Ok,

| 52, x) — fp(1,0)] < 0 (275),
|b—b(t,0)] < wp((1 + Nog)275).
Furthermore,

IDullLo + 1101l Log = (1 + No)(I Ditll Lo + 197kl Lo )-

Therefore, it is sufficient to bound . In the rest of the proof, we estimate the solution to (5-15) and abuse
the notation to use u instead of & for simplicity. By scaling, translation and covering arguments, we also
assume u satisfies the equation in Q5.

The proof is similar to the case o € (1, 2) and we indeed proceed as in the previous case. Take pq to
be the first-order Taylor’s expansion of u@™) in x at (z,0), where 1™ is the mollification of u in the
x-variable only, as in Case 2. We also assume that the solution v to the equations

dv=L(t.0)v+ f(t,0)=d;po in Qyx.
b= 1— py in ((~27%7.0) x BS_,) U ({r=—27%7} x Bys),

exists without carrying out another approximation argument. By Proposition 5.1 with 0 =1 and Lemma 2.4
in [Dong and Zhang 2016a],

o0
[v])lc—ka;Qz_k_l =C Z 2k_j MJ + Czk[v]aa‘X;QZ—k

j=1
o
<C 2k=i inf [u(t,)—pls.n .+ C2K[]~.
; te(—z—ng,O) PEPx[ ) p]“’Bzf—k [ ]“’Qr"
k .
<C Y 2k swp inf [u(t.) = plyp,,_, +Cluly + czk[v]g;QZ_k. (5-16)
21 te(-2kog) PEPx

From (5-16) and the interpolation inequality, we obtain
[U o pl]z;QZ—k—kO
k

<CokHkON "ok=) qup inf [u(t,)—pl%, sz_k+C2—k0[u]§;Q2_k+c2—<k+k0)[u]§, (5-17)

D1 te(=2ko) PEPx
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where pq is the first-order Taylor’s expansion of v in x at (¢, 0). Next w := u — pg — v satisfies

d;w=L(.0)w+Cr inQyk,
w=0 in (=27%,0) x BS_ ) U ({t=—27%} x Byx),

where by the cancellation property,

Cr = f — f(t,0)+ (b—b(t,0)Vu+ (L — L(z,0))u,
so that
|Cel < 0 Q) +wp (14+No)2 ) | Dull Lo (0, 1)

o0

+Ca)a((1+N0)2_k)( sup  » 27079 qup inf [u(z,-)—p]i.‘,;gz_j(xo)+||u||Loo)-

(t0:X0)€Q,—k o te(to—2-70,19) PEVx
Clearly, for any r > 0,
@o((1+ No)r) = (2+ No)w(r).
Therefore, similar to (5-11), we have
[Wle,e;0, &
<o 7k(1=o) [wf Q™) +0p @) I DullL o0, 1)

o0

+wa(2—k)( sup 27070 sup inf [u(z,~)—p]i:,;32_j(xo)+||u||Loo)] (5-18)

(t0,x0)€Q5—k j—q te(to—2-1919) PEPx

From the proof of (2-16) and the triangle inequality,

X x _ X < ) i D) — pl¥
Mo, =W, +lu—poilyo, , =Wlaio, , +C,€(_S‘;Pk,0) plengx[u(l, )= Plap,_, -

For/ =1,2,..., let Ql = Q_,—. Similar to (5-8), by combining (5-17) and (5-18), shifting the
coordinates, and using the above inequality, we obtain for / > 1 and k >/ + 1,

9 (k+ko)(1—a) sup sup inf [u(tw)—p]i.i;g s
(t0.x0)€Q" 1e(to—2~K+h0)7, 1) PEP 2w
k
< 2~ ktko Z 2k=7 sup sup inf [u(, ')_P]z;sz,k (x0)
=0 (to,x0)€Q! te(ty—27ko,19) PEx

+C2ko(1=) |:wf(2_k)+(l)b(2_k)||D”“Loo(QH'l)

o0
+wa(2_k)( 2/ (1=a) sup sup inf [u(t,-)—pl: B +||u||Loo):|
Z(z (t0,%0)€ Q! 1€(tg—277,10) PP Bz (o)

+C o ktko)er,1x (5-19)



1530 HONGIJIE DONG, TIANLING JIN AND HONG ZHANG

which by summing in k =/+ 1,/ 4 2,... implies
o0
Z pletko-) g sup inf [u(t,)=plap .\ (xo)
Payaty (t0.x0)€Q! 1e(tg—2~k+hk0)0, 1) PEPx e
< 2 ko iﬂ(l_“) su su inf [u(t,-)—pls
= j=0 (to,xo)epQ’+1 tG(to—ZI—)fa,to) PEPx ’ @By (o)

o0
2 RotDap ey cokol=e) 3™ ) (27F)

k=I+1
o0
AR [wb@—k)nDuHLw(Q,H)
k=I+1
et .
+wa(2—k)(221(1—w) sup sup inf [u(t,-)—ply. . (x0)+||u||Loo)],
j=0 (t0,x0)€Q!+1 re(tg—270,19) PP 2

where for the first term on the right-hand side of (5-19), we replaced j by k — j and switched the order
of the summation as before. Therefore,

o0
2/0=0) gy sup inf [u(t,-)—pl>.5 .
j;) (t0,x0)€Q! 1€(tg—2-1,10) PEPx %8y 00)

o0

< C 2 koa 7Jj(1—a) sup sup inf [u([’.)_p]x_B -
jg(:) (to,x0)€Q! T te(to—2779,19) DEPx a; B, j (xo)

o
+C2(1+k0)(1_“)[u]§+C2k°(1_a) Z a)f(2_k)

k=I+1
o
+C2k00=® N 6, 7| Dull . gi4)
k=I+1
(o,] o0 .
+C2kolI=0) 37 wa<2—k)(zzf“—“> sup sup  inf [u(u-)—p]i.i;Bzj(x(,)+||u||Loo).
k=I+1 j=0 (to,x0)€Q! T re(t9—2779,19) PE">

Then we choose k¢ and then [ sufficiently large, and apply Lemma 2.1(iii) (actually the proof it) to get

oo

270=0)  gqup sup inf [u(t,-)—ply.p .
;) (t0,x0)€Q! te(tg—2-110) PEPx a0
1 oo
<1 2](1—“) Sup Sup lnf [u(f ') _p]x
— ’ ;B —J
4]';0 (t0,x0)€Q! 1 1e(to—2—10,19) PEPx a0

00
+ C2(k0+l)(1_a)||u||f; +C Z a)f(Z_k).
k=1
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This implies

o0 o0
> 2707 sup sup inf [u(t.) = plyp, | () = Cllully +C Y or @75,
j=0 (t0,%0)€Q! 1€(t9—271719) PP k=1
from which (5-1) follows. O

Proof of Theorem 1.5. As before, Theorem 1.5 follows from Proposition 5.2 using the argument of
freezing the coefficients. We only present the detailed proof of Theorem 1.5 for o € (1,2). We omit the
proof of the case o € (0, 1] since it is almost the same and actually is simpler.
Indeed, the proof here for o € (1, 2) is almost identical to that of Theorem 1.1, so we just sketch it.
Without loss of generality, we assume the equation holds in Q3.

Step 1: For k = 1,2, ..., define Q% := Q5. Letng € C(;"’(Qk”) be a sequence of nonnegative
smooth cutoff functions satisfying n = 1 in QK*2, |p| < 1in Q%*3, and 187 Dy Lo = C2kG+)) for
each i, j > 0. Set vy := un; € C'°F and notice that in ok+1,

0rvk = N 0su + 0¢npu = ng Lu + ngbDu + ny [+ d¢ngu

= Lvg +bDvg —buDng + hy + i f + 0enpeu,
where
Ex(t,x, y)a(t, x, y)

hy =ngpLu— Ly, = Y
Rd |y|dte

and
Ek(tvx’y) = u(t,x+y)(77k(t,x+y)—nk(t,x))—y-an(Z,x)u(t,x)

= u(t, x + )it x + y) — e (t, x))  since Dy = 0 in QKT

We will apply Proposition 5.2 to the equation of vy in Qk *1 and obtain corresponding estimates for vy
in OX.

As before, we have ny f = f, d;ngu =0, and buDng =0 in Qk‘H. Thus, we only need to estimate
the moduli of continuity of Ay in QK+! with respect to x. The same proof of (3-31) shows that

o0
wop(r):=C (z”k ull Loz + Y 277 wu (2 ))wa(r) +C2K 0, (r) + C2¥OD || L 0oy (5-20)
j=0
As in the proof of Theorem 1.1, by making use of Proposition 5.2 to v and interpolation inequalities,
an iteration procedure will lead to

o0
. ga < CllullLoo(os) + € D Q77 wu(2)) + 0u(277) + 0 (277)). (5-21)
Jj=0
Applying this to the equation of u(z, x) — u(z, 0) gives to (1-10).
Finally, since ||vq ||} is bounded by the right-hand side of (5-21), from (5-14), we see that

o0

270 sup sup inf [u(t,) = Pla:p,_ (xg) =€
1';0 (to,x0)€Q! te(to—2-79%15) PEPx #iams (0)

for some large /.
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This and (5-13) with u replaced by v; and f replaced by iy + 11 f + 9;n1u —buDn, give

o0

j+ko)(o— ,
Z 2tk =) gy sup inf [v1 — pl.p ke (x0)
j=ki+1 (t0,x0)€ QK1 1€(tg—2=U k07, 1) PEPx 2

[e.®]
< 2R 4 €250 N (0, (27) + 0a (7)) + 0k (27) + wp(27) +277%).
j=ki
Here we also used (5-20) with k = 1. Therefore, for any small ¢ > 0, we can find k sufficiently large,
then k; sufficiently large, depending only on C, o, Ny, o, wg, @y, wp, and w,, such that

[e.e]
Z 20 Fko)o—e) gy sup inf [v; — p]

< é&.
: )
j=ki+1 (t0,x0)€ QX1 1€(tg—2=U ko) 1) PEPx

X
B, j—ky (X0

This, together with the fact that vi = u in Q 1 and the proof of Lemma 2.1(ii), indicates that

sup [u])é'Qr(tO xg) >0 asr—0
(t0,x0)€Q1/2 ’ ’
with a decay rate depending only on d, A, Ny, A, wa, wf, wp, wy, and o. Also, by evaluating (1-7)
on both sides and making use of the dominated convergence theorem, we have that d,u is uniformly
continuous in x in Q1 with a modulus of continuity controlled by d, o, A, A, wg, wyr, wy, No, wp,
and [lul|z..
Hence, the proof of the case when o € (1, 2) is completed. |

Proof of Theorem 1.6. Given the proofs of Theorems 1.3 and 1.4, Theorem 1.6 can be similarly proved
(actually simpler), and we omit the details. O
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SQUARE FUNCTION ESTIMATES FOR THE BOCHNER-RIESZ MEANS

SANGHYUK LEE

We consider the square-function (known as Stein’s square function) estimate associated with the Bochner—
Riesz means. The previously known range of the sharp estimate is improved. Our results are based on
vector-valued extensions of Bennett, Carbery and Tao’s multilinear (adjoint) restriction estimate and an
adaptation of an induction argument due to Bourgain and Guth. Unlike the previous work by Bourgain
and Guth on L? boundedness of the Bochner—Riesz means in which oscillatory operators associated to
the kernel were studied, we take more direct approach by working on the Fourier transform side. This
enables us to obtain the correct order of smoothing, which is essential for obtaining the sharp estimates
for the square functions.

1. Introduction

We consider the Bochner—Riesz mean of order «, which is defined by

7@7@)=(1—ﬁ) f®. (=0 terl dz2.

Let 1 < p < oo. The Bochner-Riesz conjecture is that the estimate

IRY fllp =Clflp (1)
holds (except for p = 2) if and only if
. 1 1 1
a>a(p)—max(d 3 p| 2,0). (2)

The Bochner—Riesz mean, which is a kind of summability method, has been studied in order to understand
convergence properties of Fourier series and integrals. In fact, for 1 < p < oo, L? boundedness of
RY implies RY f — f in L? as t — oo. The necessary condition (2) has been known for a long time
[Fefferman 1971; Stein 1993, p. 389].

When d = 2, the conjecture was verified by Carleson and Sjolin [1972]; also see [Fefferman 1971]. In
higher dimensions d > 3, the problem is still open and partial results are known. The conjecture was shown
to be true for max(p, p’) > 2(d +1)/(d — 1) by an argument due to Stein [Fefferman 1970], also see
[Stein 1993, Chapter 9], and the sharp L? > L = restriction estimate (the Stein—Tomas theorem) for
the sphere [Tomas 1975; Stein 1986]. It was Bourgain [1991a; 1991b] who first made progress beyond this
result when d = 3. Since then, subsequent progress has been tied to that of the restriction problem. Bilinear
or multilinear generalizations under transversality assumptions have turned out to be the most effective and

MSC2010: primary 42B15; secondary 35B65.
Keywords: square function, Bochner-Riesz means.
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fruitful tools. These results have propelled progress in this area and there is a large body of literature on
restriction estimates and related problems. See [Tao et al. 1998; Tao and Vargas 2000a; Wolff 2001; Tao
2003; Lee and Vargas 2008; 2010; Lee 2004; 2006a; 2006b] for bilinear restriction estimates and related
results, [Bennett et al. 2006; 2015; Bourgain and Guth 2011; Lee and Vargas 2012; Bourgain 2013; Temur
2014; Bourgain and Demeter 2015; Bennett 2014; Bejenaru 2016; 2017; Ramos 2016] for multilinear
restriction estimates and their applications, and [Guth 2016a; 2016b; Shayya 2017; Du et al. 2017; Zhang
2015; Ou and Wang 2017] for the most recent developments related to the polynomial partitioning method.

Concerning improved L? boundedness of the Bochner-Riesz means in higher dimensions, the sharp
L? bounds for the Bochner—Riesz operator on the range max(p, p’) > 2(d + 2)/d were established by
the author [Lee 2004], making use of the sharp bilinear restriction estimate due to Tao [2003]. When
d > 5, further progress was recently made by Bourgain and Guth [2011]. They improved the range of
the sharp (linear) estimates for the oscillatory integral operators of Carleson—Sjolin-type with phases
that additionally satisfy an elliptic condition (see [Stein 1986; Bourgain 1991c; Lee 2006a] for earlier
results) by using the multilinear estimates for oscillatory integral operators due to Bennett, Carbery and
Tao [Bennett et al. 2006] and a factorization theorem. Also see [Carleson and Sjolin 1972; Hérmander
1973; Stein 1986; 1993, Chapter 11] for the relationship between the Bochner—Riesz problem and the
oscillatory integral operators of Carleson—Sjolin-type.

The following is currently the best known result for the sharp L# boundedness of the Bochner—Riesz
operator.

Theorem 1.1 [Carleson and Sjolin 1972; Lee 2004; Bourgain and Guth 2011]. Letd > 2, p € [1, <],
and po be defined by

Do = pold) =2 if d =k (mod3), k=—1,0, 1. 3)

N 12
4d —3—k
If max(p, p') = po, then (1) holds for « > a(p).T

There are also results concerning the endpoint estimates at the critical exponent « = «(p); for example,
see [Christ 1987; 1988; Seeger 1996; Tao 1996]. It was shown by Tao [1998] that the sharp L? bounds
of RY for 1 < p < po <2d/(d — 1) imply the weak-type bounds of R?(p ) for 1 < p < po. We refer
interested readers to [Lee et al. 2014] for variants and related problems.

Square function estimate. We now consider the square function G¥f which is defined by

2\
tdl).

It was introduced by Stein [1958] to study the almost-everywhere summability of Fourier series. Due to

>l a
gs0 = ([ e o

the derivative in ¢, the square function behaves as if it is a multiplier of order & — 1 and the derivative d/d¢
makes an L? estimate possible by mitigating bad behavior near the origin. In this paper we are concerned

TFor the sharp bound for max(p, p’) > ps«, we have the following relationships: bilinear, px = 2+ 4/d; multilinear,
px =3 +3/d + 0(d2); conjecture, px =2+2/d + 0(d~?).
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with the estimate
1G*fllp <CI fllp- 4)

The L? estimate for the square function has various consequences and applications. First of all, it is
related to smoothing estimates for solutions to dispersive equations associated to radial symbols such as
wave and Schrodinger operators. See [Lee et al. 2012; 2013] for the details; see also Remark 3.3. The
sharp square-function estimate implies the sharp maximal bounds for Bochner—Riesz means, which will be
discussed below in connection to pointwise convergence. It also gives L? and maximal L? boundedness of
general radial Fourier multipliers, especially the sharp L? boundedness result of Hormander—Mikhlin-type;
see Corollary 1.3 below and [Carbery et al. 1984; Carbery 1985; Lee et al. 2012].

For 1 < p <2, the inequality (4) is well understood. In this range of p, we know G* is bounded on
L? if and only if « > d (% — %) + %; see [Sunouchi 1967; Lee et al. 2014]. Sufficiency can be shown by
using vector-valued Calderén—Zygmund theory. In contrast with the case 1 < p <2,if p > 2,due to a
smoothing effect resulting from averaging in time, the problem has more interesting features and may
be considered as a vector-valued extension of the Bochner—Riesz conjecture in that its sharp L? bound
also implies that of the Bochner—Riesz operator. The condition o > max{%, d (% — %)} is known to
be necessary for (4), see, for example [Lee et al. 2014], and it is natural to conjecture that this is also
sufficient for p > 2. This conjecture in two dimensions was proven by Carbery [1983], and in higher
dimensions d > 3, sharp estimates for p > 2(d + 1)/(d — 1) were obtained by Christ [1985] and Seeger
[1986] and it was later improved to the range of p > 2(d + 2)/d by the author, Rogers, and Seeger
[Lee et al. 2012]. There are also endpoint estimates at the critical exponent « = d/2 — d / p and weaker
LP2 — LP endpoint estimates were obtained in [Lee et al. 2014] for 2(d +1)/(d — 1) < p < oo.

There are two notable approaches for the study of the Bochner—Riesz problem. One, which may be
called the spatial-side approach, is to prove the sharp estimates for the oscillatory integral operators of
Carleson—Sjolin-type [Carleson and Sjolin 1972; Hormander 1973; Stein 1986]. These operators are
natural variable coefficient generalizations of the adjoint restriction operators [Bourgain 1991c; Lee 2006a;
Wisewell 2005] for hypersurfaces with nonvanishing Gaussian curvature such as spheres, paraboloids, and
hyperboloids. The other, which we may call the frequency-side approach, is more related to the Fourier
transform side, based on a suitable decomposition in the frequency side and orthogonality between the
decomposed pieces [Fefferman 1973; Carbery 1983; Christ 1985; 1987; Seeger 1996; Tao 1998; Lee
2004]. As has been demonstrated in related works, the latter approach makes it possible to carry out finer
analysis and to obtain refined results such as the sharp maximal bounds, square-function estimates, and
various endpoint estimates.

The recently improved bound for the Bochner—Riesz operator in [Bourgain and Guth 2011] was
obtained from the sharp estimate for the oscillatory integral operators of Carleson—Sjolin-type with an
additional elliptic assumption. However, this approach doesn’t seem appropriate for the study of the
square function. In particular, there is an obvious difficulty when one tries to make use of the disjointness
of the singularity of the Fourier transform of RY f* which occurs as ¢ varies; for example, see (76). This is
where the extra smoothing of order % for the square-function estimate comes in, which is most important
for the sharp estimates for G* f [Carbery 1983; Christ 1985; Lee 2004; Lee et al. 2012]. This kind
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of smoothing can be seen clearly in the Fourier transforms of Bochner—Riesz means but is not easy to
exploit in the oscillatory kernel side. As is already known [Bourgain 1991c; Wisewell 2005; Lee 2006a;
Bourgain and Guth 2011], the behavior of the oscillatory integral operators of Carleson—Sjolin-type are
more subtle and generally considered to be difficult to analyze when compared to their constant-coefficient
counterparts, the adjoint restriction operators. So, we take the frequency-side approach, in which we
directly handle the associated multiplier by working in the frequency space rather than dealing with the
oscillatory integral operator given by the kernel of the Bochner—Riesz operator.
In this paper, we obtain the sharp square-function estimates which are new when d > 9.

Theorem 1.2. Let us define ps = ps(d) by

12
4d —6—k’
Then, if p > min(ps,2(d +2)/d) and @ > d/2—d/ p, the estimate (4) holds.

ps =2+ d=k (mod3), k=0,1,2. (5)

The range here does not match that of Theorem 1.2. This results from an additional time average
which increases the number of decomposed frequency pieces. (See Section 3F.)

Maximal estimate and pointwise convergence. A straightforward consequence of the estimate (4) is the
maximal estimate

[sup 1R f1], < €I/l ©)

for o > a(p), which follows from Sobolev imbedding and (4). Hence, Theorem 1.2 yields the sharp
maximal bounds for p > ps(d). When p > 2, it has been conjectured that (6) holds as long as (2) is
satisfied. The sharp L2 bound goes back to Stein [1958]. The conjecture in R? and the sharp bounds
for p > 2(d +1)/(d —1), d > 3, were verified by square-function estimates [Christ 1985; Seeger
1986]. The bounds were later improved to the range p > 2(d + 2)/d by the author [Lee 2004] using
an L? — LP(L%) estimate. The inequality (6) has been studied in connection with almost-everywhere
convergence of Bochner-Riesz means. However, the problem of showing RY f — f a.e. for f € L?,
p > 2, a > a(p), was settled by Carbery, Rubio de Francia and Vega [Carbery et al. 1988]. Their
result relies on weighted L2 estimates. There are also results on pointwise convergence at the critical
o = a(p). See [Lee and Seeger 2015; Annoni 2017]. When 1 < p < 2, by Stein’s maximal theorem
almost-everywhere convergence of RY f — f for f € L? is equivalent to the L? — LP>*° estimate for
the maximal operator and it was shown by Tao [1998] that the stronger condition @ > (2d —1)/(2p)—d /2
is necessary for (6). Except for d = 2 [Tao 2002], little is known beyond the classical result which follows
from interpolation between L2 (« > 0) and L' (a > (d — 1)/2) estimates.

Radial multiplier. Let m be a function defined on R4.. Combining the inequality due to Carbery, Gasper
and Trebels [Carbery et al. 1984] and Theorem 1.2, we obtain the following L? boundedness result of
Hormander—Mikhlin-type, which is sharp in that the regularity assumption cannot be improved. A similar
result for the maximal function f — sup,-q |[F 1 (m(z|-]) f )| is also possible thanks to the inequality
due to Carbery [1985].
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Corollary 1.3. Let d > 2, and ¢ be a nontrivial smooth function with compact support contained in

(0, 00). If min(py,2(d +2)/d) <max(p, p’) <occand a > d |t — 1| then
D 2

|77 im0 A1, < sup llpm (¢ )l f -

About the paper. In Section 2, by working in the frequency side we provide an alternative proof of
Theorem 1.1. Although, this doesn’t give an improvement over the current range, we include this because
it has some new consequences, clarifies several issues which were not clearly presented in [Bourgain and
Guth 2011], and provides preparation for Section 3, in which we work in a vector-valued setting. The
proof in that paper is sketchy and doesn’t look readily accessible. Also the heuristic that a function with
Fourier support in a ball of radius o behaves as if it is constant on balls of radius é is now widely accepted
and has important role in the induction argument but it doesn’t seem justified at high level of rigor. We
provide a rigorous argument by making use of Fourier series (see Lemmas 2.13 and 3.14). Another
problem of the induction argument is that the primary object (the associated surfaces or phase functions)
changes in the course of induction. However, these issues are not properly addressed in literature. We
handle this matter by introducing a stronger induction assumption (see Remark 2.4) and carefully handling
the stability of various estimates. We also use a different type of multilinear decomposition which is more
systematic, easier and more efficient for dealing with multiplier operators (see Section 2E, especially the
discussion at the beginning of Section 2E).

Section 3 is very much built on the frequency-side analysis in Section 2, as it may be regarded a
vector-valued extension of Section 2. Consequently, the structure of Section 3 is similar to that of Section 2
and some of the arguments commonly work in both sections. In such cases we try to minimize repetition
while keeping readability as much as possible. We first obtain vector-valued extensions of multilinear
estimates (Propositions 3.6 and 3.10) which serve as basic estimates for the sharp-square function estimate.
Then, to derive the linear estimate (Theorem 1.2) we adapt the frequency side approach in Section 2 to
the vector-valued setting and prove our main theorem.

Finally, the oscillatory integral approach has its own limits for proving Bochner—Riesz conjecture. As
is now well known [Bourgain 1991c; Wisewell 2005; Lee 2006a; Bourgain and Guth 2011], the sharp
LP-11 estimates for the oscillatory operators of Carleson—Sjolin-type fail for ¢ < go, go > 2d/(d — 1),
even under the elliptic condition on the phase [Wisewell 2005; Lee 2006a; Bourgain and Guth 2011].
The Fourier-transform-side approach may help further development in a different direction and thanks to
its flexibility may have applications to related problems.

Notation. The following is a list of notation we frequently use in the rest of the paper:
e C, c are constants which depend only on d and may differ at each occurrence.

e For A, B >0, we say A < B if there is a constant C such that A < CB.

o I =[-1,1]and 19 =[-1,1]9 Cc R4

7, f(x) = f(x —h) and 7; f denotes 5, f for some h; eRe i=1,....m.
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We denote by q(a, £) C R¥ the closed cube centered at a with side length 2¢, namely, a + ¢1¢. If
q = q(a, £), denote a, the center of q, by c(q).

e For r > 0 and a given cube or rectangle (, we denote by rQ the cube or rectangle which is the
r-times dilation of Q from the center of Q.

e Let p € S(R?) be a function with Fourier support in q(0, 1) and p > 1 on q(0, 1). And we also set
PB(z,r)(x) == p((- —2)/7).
e For a given set A C R¥, we define the set A + O(8) by

A+ 0(8) := {x e R? : dist(x, A) < C$§}.

* For a given dyadic cube g and function f, we define f; by f qa= Xq f .

e Besides " and , we also denote by F(-) and F~!(-) the Fourier transform and the inverse Fourier
transform, respectively.

e For a smooth function G on ¥, we set G e (1x) := max|q <y maxyepx [0¥G(X)].

2. Estimates for multiplier operators

In this section we consider the multiplier operators of Bochner—Riesz-type which are associated with
elliptic-type surfaces. They are natural generalizations of the Bochner—Riesz operator RY. We prove
the sharp L? boundedness of these of operators and this provides an alternative proof of Theorem 1.1.
Basically we adapt the induction argument in [Bourgain and Guth 2011]. However, compared to the
(adjoint) restriction counterpart, the induction argument becomes less obvious when we consider it for
the Fourier multiplier operator. However, exploiting sharpness of bounds for the frequency-localized
operator Ty, see (9)—(10), we manage to carry out a similar argument. See Section 2F.
From now on we write

£=(67)eRITIXR.

Let ¥ be a smooth function defined on /¢ and y, be a smooth function supported in a small neighborhood
of the origin. We consider the multiplier operator 7% = T%(y) which is defined by

FT)(E) = (r =¥ ()% 1o (€) £ (©).

By a finite decomposition, rotation and translation and by discarding the harmless smooth multiplier,
it is easy to see that the L? boundedness of R is equivalent to that of 7%, which is given by ¥ ({) =
I-(1-1¢ |2)%. A natural generalization of the Bochner—Riesz problem is as follows: If det Hy # 0 on
the support of yo (here, H is the Hessian matrix of 1), we may conjecture that, for 1 < p < oo, p #2,

ITfllp = ClLfllp @)

if and only if @ > a(p). From explicit computation of the kernel of T¢ it is easy to see that the condition
o > a(p) is necessary for (7). However, in this paper we only work with specific choices of .
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2A. Elliptic function. Let us set
Yo(§) = 3¢,

For 0 < &0 K % and an integer N > 100d we denote by &(e,, N) the collection of smooth functions
which is given by
G(eo, N) ={V : |[¥ —Yolcnga-1) < €}

If € (g0, N) and a € %Id_l, then H (a) has eigenvalues Aq,...,A7_1 close to 1 and we may
write Hy(a) = P! DP for an orthogonal matrix P, while D is a diagonal matrix with diagonal entries
Al....Ag—1. We denote by /Hv (a) the matrix P~1D’P, where D’ is the diagonal matrix with

diagonal entries /A1, ..., VAg—1. So, (VHV (a))?> = Hy (a).

ForweQi(eo,N),ae 21d Land0<e < i,wedeﬁne

Ve = S (W EVAV@I ' + @) (@ — eV (@) VA @] 7). ®

Since ¥ € B(eo, N), by Taylor’s theorem it is easy to see that ||V~ || cv (ja-1y < Ce for ¥ € &(eo, N).T
Hence we get the following.

Lemma 2.1. Let € &(eo, N) and a € %Id_l. Then there is a constant kK = k(&o, N), independent
of a,Vy, such that ¥} € B(eo, N) provided that 0 < & < k.

Remark 2.2. If ¢ is smooth and H v (a) has d — 1 positive eigenvalues, after finite decomposition and
affine transformations we may assume ¥ € &(g., N) for arbitrarily small ¢, and large N. Indeed, for
given ¢ > 0, decomposing the multiplier (z — ¥(£))3 xo(§) to multipliers supported in balls of small
radius ¢/ C with some large C, one may assume that F f is supported in B((a, ¥ (a)),e/C). Then, the
change of variables (12) transforms ¥ — v/ and gives rise to a new multiplier operator 7%(y?) and,
as can be easily seen by a simple change of variables, the operator norm ||7%(¥})| p— p remains same.
(See the proof of Proposition 2.5.) By Lemma 2.1 we see ¥ € &(go, N) if ¢ is small enough.

2B. Multiplier operator with localized frequency. Let ¢ be a smooth function supported in 2/. For
8>0, ¥ €B(go, N), and f with Fourier transform supported in %I 4 we define the (frequency-localized)
multiplier operator Ts = Ts() by

T57 (&) = ( "’“))f@) ©)

As is well known, the L? bound for Ty largely depends on the curvature of the surface © = {({). By
decomposing the multiplier dyadically away from the singularity T = 1/ ({), in order to prove (7) for
p>2d/(d—1) and @ > a(p), it is enough to show that, for any & > 0,

175 £llp < €85~ 2| £1, (10)

174 The following recovers the sharp L? bound up to the currently best

whenever f is supported in 3
known range in [Bourgain and Guth 2011].

TIndeed, since 3% (¥ — Vo)| < &1*1=2 for any multi-index o, we need only to show |9% (WE — o) Sefora| =0.1,2.
This follows by Taylor’s theorem since N > 100d.
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Proposition 2.3. Let ¢ > 0. If p > po(d) and &. is small enough, there is an N = N(g) such that (10)
holds uniformly provided that € (e, N) and supp f C %I 4

It is possible to remove the loss of §7¢ in (10) by the e-removal argument in [Tao 1998, Section 4].

Induction quantity. To control the L? norm of Ty, for 0 < §, we define A(6) = A,(§) by

A@) = sup{[I Ts(¥) fllLr = ¥ € B(eo, N), || fllp <1, supp f € 517}

Remark 2.4. Though the induction argument in [Bourgain and Guth 2011] heavily relies on the stability
of the multilinear estimates, such issue doesn’t seem properly addressed. In particular, after (multiscale)
decomposition and rescaling, the associated phase functions (or surfaces) are no longer fixed-phase
functions (or surfaces).” This requires the induction quantity defined over a class of phase functions or
surfaces. This leads us to consider A(§).

From the estimate for the kernel of Ts (see Lemma 2.9), it is easy to see that A(§) < C uniformly in
Y e€®B(eo, N)if § > 1 and A(S) < Cs~ T if0 <8 < 1, because the L!-norm of the kernel is uniformly
0(8_%). To prove Proposition 2.3, we need to show A(5) < 8%_%_8 for any ¢ > 0. However, due
to the lack of monotonicity A(§) is not suitable for closing the induction. So, we need to modify A(§).
For 8, § > 0, we define

AB§) = AB(8):= sup 5T 5P AL(s).
4 P
§<s<l1
Hence, Proposition 2.3 follows if we show AP (6) < C for any B > 0.

The following lemma makes precise the heuristic that the bound of Ts improves if it acts on functions
with Fourier transforms supported in a smaller set. However, this becomes less obvious for the multiplier
operator when it is compared to the restriction (adjoint) operator; see [Bourgain and Guth 2011]. This
type of improvement is basically due to the parabolic rescaling structure of the operator, and generally
appears in L? — 9 estimates for p, g satisfying (d +1)/q < (d —1)(1—=1/p), p < g, which are not
invariant under the parabolic rescaling. The following is important for the induction argument to work.

Proposition 2.5. Let 0 < § < 1, ¥ € &(go, N), and (a, ) € R4~ x R. Suppose that suppf C
q((a, n), &) C %Id, O<e< % and 8 < (10)™2¢2 Then, there is a k = k (g0, N) such that for 0 < & < k

ITs fllp < CAE28)1 Il (11)
holds with C independent of W and e.

Proof. Decomposing q(a, £) into as many as O(d?), we may assume f is supported in q((a, 1), e/ (10d)).

Since ¥ € B(e,, N) and supp f Cq((a, pn),e/(10d)), by Taylor’s theorem we have ¢((I—W(§))/8)f(§),
which is supported in the set

2
€D :ile—y@—-Vy@)- ¢ -a) < %

It is only true for the paraboloid.
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Hence, we may write

¢( W(K))f(g) ( lﬁ(é)) (f—lﬂ(a) V(a)- (€ - a))f(é),

2

where ¥ is a smooth function supported in %I such that ¥y = 1 on %I .Letusset M = (\/Hy(a))"! and
make the change of variables in the frequency domain

(. 1) > L, 1) = (Ml +a,*t +y(a) +eVy(a)- MO). (12)
Then it follows that
T—Y5(0)
g72§

Since L is an invertible affine transformation, it is easy to see

FT5 ) f)(LE) = ¢( )ﬂr)f(Ls).

177 @Yl = e9HVGD g,

for any g. We also note that supp(j(7) f (L)) C %I 4 and by Lemma 2.1 there exists a k > 0 such that
Vi € &(eo, N) if 0 < & < k whenever Y € B(go, N). So, by the definition of A(§) it follows that, for

0<e<k,
(¢( ‘”““’)x(r)f(Lé))
4

< eTV0=5) 4 728) | F 1 (7(0) F (LE) p < CAE28) 1 f -

ITs (W) £, = e@+D0-

For the last inequality we also use the trivial bound || F~1(3(2)&)|, < Cllgll, for any 1 < p < co. The
inequality is valid for any ¥ € &(g,, N). This gives the desired bound. |

We will need the following estimate which is easy to show by making use of Rubio de Francia’s
one-dimensional inequality [Rubio de Francia 1985].

Lemma 2.6. Let {q} be a collection of (distinct) dyadic cubes of the same side length 0. Let 2 < p < o0.
Then, there is a constant C, independent of the collection {q}, such that

(Z ||f—1<fxq)||;;)” <Clfly.
q

2C. Multilinear estimates. In this subsection we consider various multilinear estimates which are basi-
cally consequences of multilinear restriction and Kakeya estimates in [Bennett et al. 2006].
For i € (o, N) let us set

T=T®)={Cy©):te31? "}
Let2 <k <d, and let Uy, U, ..., Uy be compact subsets of 191 Fori=1,...,k,and A > 0, set
L ={¢y(©):¢eli}, Ti(h)=Ti+ 0Q).
For £ = (£, ¥ (¢)) € (), let N(§) be the upward unit normal vector at (¢, ¥ ({)).
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For vy, ..., v € R, denote by Vol(vy, ..., vg) the k-dimensional volume of the parallelepiped given
by {s1v1 +---+spvg :s; €[0,1], 1 <i <k}. Transversality among the surfaces I'1, ..., [y is important
for the multilinear estimates. The degree of transversality is quantitatively stated as follows:

VoI(N(§1). N(§2). ... .N(§¢)) = o (13)

for some o > 0 whenever & € I;, i = 1,...,k. Since ¢ € &(g,, N), we know Vi is a diffeo-
morphism which is close to the identity map. The condition (13) may be replaced by a simpler one:
Vol(¢1, 8o, ..., Lk|) 2 0 whenever §; € U;, i = 1,...,k. The following is due to Bennett, Carbery and
Tao [Bennett et al. 2006].

Theorem 2.7. Let 0 <§ K 0 K 1 and ¥ € B(eo, N). Suppose that 'y, . .., Ty are given as in the above
and (13) is satisfied whenever & € T';, i =1, ..., k, and suppose that ﬁ} crIi),i=1,....k. Then,if
p > 2k/(k—1) and g, is sufficiently small, for ¢ > O there are constants N = N (&) such that, for x € R4,

k
[]F

i=1
holds with C, Cg, independent of V.

k
<Co=C s [ 8211F12
Lr/k(B(x,671)) i=1

Besides the stability issue, this estimate is essentially the same as the multilinear restriction estimate in
[Bennett et al. 2006]; see Theorem 1.16 of that paper, as well as Lemma 2.2, for the case k = d and see
Section 5 for the case of lower linearity 2 < k < d. Though we are considering only the surfaces which
are the graphs of ¥ € &(¢&,, N), the theorem remains true for surfaces even with vanishing curvature as
long as the transversality condition is satisfied. Uniformity of the estimate follows from the fact that the
multilinear Kakeya and restriction estimates are stable under perturbation of the associated surfaces. The
estimate is conjectured to be true without § ¢ loss (this is equivalent with the endpoint k-linear restriction
estimate) but it remains open when k > 3 even though the corresponding endpoint case for the multilinear
Kakeya estimate was obtained by Guth [2010].

Remark 2.8. The proof of Theorem 2.7 is based on the multilinear Kakeya estimate and an induction-
on-scale argument, which involves iteration of the induction assumption to reduce the exponent of §~1.
Such an improvement of exponent is possible at the expense of extra loss of bounds in terms of 67¢. By
following the argument in [Bennett et al. 2006], one can easily see that one may take C, < C log %; see
the paragraph below (20). Hence, the bound becomes less efficient when o gets as small as §¢ for some
¢ > 0. In R3 the sharp bound depending on o was recently obtained by Ramos [2016]. However, the
argument of Bourgain and Guth avoids such problems by keeping the Fourier supports of functions largely
separated while being decomposed. In contrast with the conventional approach in which functions are
usually decomposed into finer frequency pieces, this was achieved by decomposing the input functions
into those of relatively large frequency supports.

Lemma 2.9. Let 9 € C2°(21) and n€ C°(I?), where 3 <n<2. Let0 <§ < 0 < 1. Set

o = w(z»)m),
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and Ryr(x) = (1 +8|x|)™M. Suppose i is supported in a cube of side length Co and |8‘gi| <ol for
any «. Then, for any M, there is an N = N(M) such that

|K5(0)] < C80™ R (x) (14)
with C depending only on ||| ¢~ (ya—1).
Proof. Changing variables t — 8t + ¥ ({), we write

Ks(x) = )46 / effrr / VN (e dt .

where
n, st +v(@)r
C

5(6) = go( )z(;, 57+ 9(0).

We note that |8‘é‘¢| < 0_|“|(||w||c|a| + [nllcie). Then, if |x’|/100 > |x4|, by integration by parts it
follows that

‘ / ! xRV ) g () dz‘ < Co? (I llemga-1y + Inllem gay) (1 +olx' ™.

Note that ¢(£) = 0 if || > 5C since % < n < 1. This gives the desired inequality (14) by taking
integration in t since § < o. On the other hand, if |x’|/100 < |x;|, we integrate in t first. Since
10L3] < (¥ llc: + lInllcr), by integration by parts again we have

)/eisrxdq;(g)df

This and taking integration in ¢ yield (14). O

< C(II¥llemra—ry + Inllemgay) A+ 18xq) ™.

From Theorem 2.7 and Lemma 2.9 we can obtain the sharp multilinear L7 estimate for 75 under the
transversality condition without localizing the multilinear operator on a ball of radius %. In fact, since
Ts f = Kg = f and the kernel K5 (from Lemma 2.9) is rapidly decaying outside of B(0, C/§), one may
handle f as if it were supported in a ball B of radius § ! 7%, This type of localization and Holder’s
inequality make it possible to lift the L2 estimate to that of L?, p > 2, with sharp bound. Such an idea of
deducing L? estimates from L? ones goes back to Stein [1993, pp. 442-443], see also [Fefferman 1970;
1973], and in [Lee 2004; Lee et al. 2012] a similar idea was used to make use of the L? bilinear restriction
estimate. The same argument also works with the multilinear estimates with a little modification. We
make it precise in what follows.

Proposition 2.10. Let0<§ Ko K6 K 1 andy € B(so, N),andlet Q1, ..., Qr € %Id be dyadic cubes
of side length 6. Suppose that (13) is satisfied whenever £ e 'N Q;, i =1,...,k,and supp f; C Qj,
i=1,....k. Then,if p>2k/(k—1)and e, is small enough, for e > 0 there is an N = N(¢g) such that

k
[17s/

i=1

holds with C, Cg independent of .

k
<Co G5 [65F 1 fill (15)
Lr/k @) i=1
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Proof. Set Q; = {£ : dist(¢, Q;) < éo’}, and let j; be a smooth function supported in Q; which satisfies
Xi =1on Q; and |3‘gi,~| <ol Let us define K; by

Fk© =92 ) 1o

Since fi is supported in Q;, we have Ty f; = K; * f;.

Let {B} be the collection of boundedly overlapping balls of radius ! which cover R?. For ¢ > 0 we
denote by B the balls B(a,§~17¢) if B = B(a,5~1). By decomposing f; = x5fi + x5 fi, we bound
the (p/ k)-th power of the left-hand side of (15) by

Z/ [Tins st dx—Z/ [T1K: il dx <1411

i=1 i=1
where

1—2/1‘[|K1*<x3ﬁ Bk 11—2( )> /1‘[|K3*g,<x>|kdx)
i=1 =xgc fi i=1
forsomel

The second sum in // is summation over all possible choices of g; with g; = yzfi or yz fi, and
gi = xge fi for somei. So, in ]_[l_1 Kg * gi (x) there is at least one g; which satisfies g; = xpc fi-

Since F(K; * (xg/fi)) C T'(6) N Q,, taking a sufficiently small ¢ > 0, from continuity it is easy to
see that F'1 = K1 * (x5/1)...., Fx = Ki * (x5/k) satisfy the assumption of Theorem 2.7. So, by
Theorem 2.7 and Plancherel’s theorem we see

k y4
1507%(5) ;:Hlaz’?«umugﬁ)ufs c(5) ZH52k||xBﬁ||2

i=1

for ¢ € ® (g0, N) and &, small enough. Since p > 2, by applying Holder’s inequality twice we have

k ce k d_d—1 %
1507%(3) 1‘[5£<z+d<1+8><‘ 2))(an8ﬁnp) $07%(5) (l_[“””ff”p)-

i=1 i=1
For 11, we use Lemma 2.9. There is a constant C = C(||{/ || ¢~ (a-1y) such that |K; * (xge fi)(x)| <
C88EM—d=Dg, | x|fi|(x)if x € B, and |K; * g; (x)| < C8Rg41 * | fi|(x). Thus, we get

l)p

k k
D
118500 [T (8 el Alen dx <522 [T 141
i=1 i=1
for some c1, c2 > 0 because || Rg41% f ||, < cs™ | f || for 1 < p < oo by Young’s convolution inequality.
Combining the two estimates for / and /7 with N large enough, we see that for ¢ > O there is an N such

that

k
‘HTsfi

i=1

<co % (5)" 1‘[8*‘*||fzup

LP/K(RD) i=1

for ¢ € B(s,, N) and &, small enough. Therefore, choosing ¢ = £/¢, we get the desired bound (15). O
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In what follows we show that if the normal vectors of the surfaces are confined in a C§-neighborhood
of a k-plane in Proposition 2.11, then the associated multilinear restriction estimate has an improved
bound. In particular, if one takes p = 2k/(k — 1), the bound in (17) is ~ 8_55%, which is better than
the corresponding bound ~ §~¢§2 in Proposition 2.10. However, it seems difficult to make use of such
an improvement to get a better linear bound without using the square sum function (see Corollary 2.12
below).

Proposition 2.11. Let0<§ Ko K 1, ¥ € &(eo, N), and I1 be a k-plane containing the origin. Suppose
that T'(Y), T'1,..., Tk are given as in the above and (13) is satisfied whenever & € I';, i = 1,... k.
Suppose that

supp F; C T () NN"YIT + 0(5)), i=1,...,k. (16)

Then, if 2 < p <2k/(k —1) and &, is sufficiently small, for ¢ > 0 there is an N = N(e) such that

k k
< CoCese5* G [T I1Fil (a7)
LP/k(B(x,6—1) i=1

F;
i=1

holds with C, Cg, independent of V.

If p/k > 1, the inequality could be shown by using Holder’s inequality and the k-linear multilin-
ear restriction estimate in [Bennett et al. 2006]. However, this is not true in general and we prove
Proposition 2.11 by making use of the induction-on-scale argument and the multilinear Kakeya estimate.
The following is a consequence of Proposition 2.11.

Corollary 2.12. Suppose that the same assumptions in Proposition 2.11 hold. Let {q}, q C %I 4 be the
collection of dyadic cubes of side length £, 2728 < £ <2718, Then, if 2 < p <2k/(k —1), fore >0
there is an N = N(¢) such that, for x € R%,
k
Fi
i=1
holds with C, Cg, independent of W € &(go, N).

k

<Co Ceg—e 1_[
L»/k(B(x,671)) i=1

(18)

1
2
(Z |E-q|2) PB(x,5-1)
q

p

This may be compared with a discrete formulation of the multilinear inequality in [Bourgain and Guth
2011, (1.1), p. 1250]. The inequality (18) can be easily deduced from Proposition 2.11 by the standard
argument using Plancherel’s theorem and orthogonality; see the proof of Corollary 3.11. So, we omit the
proof.

Proof of Proposition 2.11. For p = 2 the estimate (17) follows from Holder’s inequality and Plancherel’s
theorem. Hence, in view of interpolation, it is enough to show (17) for p = 2k /(k —1).

We prove (17) by adapting the proof of the multilinear restriction estimate in [Bennett et al. 2006]. By
translation we may assume x = 0. We make the following assumption that, for 0 < § < ¢ and some « > 0,

k
1%

i=1

k
o od
<878 [TIF 2 (19)
LZ/(k—l)(B(O,S—l)) i—1
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holds uniformly for ¥ € &(eo, N) whenever (16) holds and (13) is satisfied for &; e I;, i = 1,...,k. It
is clearly true with a large o > 0, as can be seen by making use of Lemma 2.9. We show (19) implies
that, for € > 0, there is an N such that

k
< Coo 5787 T IF (20)
L2/k=1(B(0,6—1)) =1

i=1
holds uniformly for ¥ € &(go, N). In what follows we set R = §1.

Iteration of the implication from (19) to (20) allows us to suppress « as small as ~ ¢. In fact, since
the implication remains valid as long as ¥ € B(e,, N), by fixing an ¢ and iterating the implication (19)
to (20) / times, we have the bound

CSIO,—KIRz_loc—f-cs(l+2_18+~-~+2_1+1) < Cslo*_"l R2_1a+2cs.

Choosing / such that 2~/ ~ ¢ gives the bound C,oCklg s RCe Hence, taking ¢ = ¢/C, we get the
desired bound.

Let {g} be the collection of dyadic cubes (hence essentially disjoint) of side length £, £ < R: <24,
such that R = |_J ¢. Since the Fourier transform of p B(z,~/R) Fi 1s supported in re %) NN~(TT+ 0(8%)),
by the assumption it follows that

k
[17

i=1

) 2
VR L2/=1(B(z,R1/2))

L2/6=D(B(z,RV/2)) iy

k k
o d
S 67265 H g, vy Filla S 87585 T

i=1

PB(, f)(Z'Fw' ) H

Here Fjq4 is given by F(Fiq) = F,' Xq- Since the supports of F(p B(z ﬁ)lfiq) are boundedly overlapping,
the last inequality follows from Plancherel’s theorem. By the rapid decay of p we have, for a large M > 0,

k
1_[ F; < %8% l_[ AB(z, les)(z | Fig| ) H +8M l_[ I il @h

i1 L2/ (B VR) - i=1

For a given £ € N"!(I1), let {vy, ..., vx_; } be an orthonormal basis for the tangent space T (N~L(11))
at &, vy = N(§), and let vgyq, ..., vz form an orthonormal basis for (span{vy, ..., vgr_1, ve DT (So,
the vectors vy, ..., Vk_1, V41, --.» Vg depend on § € N1(IT).) Then, we define p(£) and P (£) by

p(§)=§+{x:|x-vj| fClx/g, Jj=1,...,k—1, and |x-v;| < Ci6, j =k+1,...,d},
PE) ={x:|x-v|<CV6, j=1,....0k—1, and |x-v;| <C, j =k +1,....d}.
Since N~ (IT) is smooth, N~1(IT) 4+ O(§) can be covered by a collection of boundedly overlapping
{p(Ea)}, Eo € N"I(IT) (here, we are seeing N~1(IT) as a subset of R9), such that for any ¢ there exists

&y satisfying R
supp F; Ng C 1 p(€x) (22)

with a sufficiently large C; > 0.
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For (i, q) satisfying supp Fing # @& let us denote by §; 4 the &, which satisfies (22) (if there are
more than one, we simply choose one of them). We also denote by L (i, ) the bijective affine map from
%p(éi,q) to q(0, 1). Then we define ﬁ,-q by

1
p(L(i,q)§)

We also set Pj g = P (i 4) and K; g = F 1 (p(L(i,q)-)). By RP; 4 we denote the rectangle which is
the R-times dilation of P; 4 from the center of P; 4. Also denote by ﬁ, ,¢ the set R1te P; 4 which is the
R'*¢_times dilation of P; 4 from its center. Since K; 4 * Fq = Fig and |K; 4| < xrP; ,/|RPigl, we
have, for y € B(x,2R27¢) and some ¢ > 0,

F(Fiq)¢) = Fiq ().

XRP;,

Xp
—|RP | |F1q| (J’)<RCS |qu| (x).
iq

|Fig(0)* = |Ki gl *|Fig*(y) < |
Pig4

The last inequality is trivial since |13',-’q| ~ R°®|RP; 4| for some ¢ > 0. Hence, for x, y € B(z, R%"'e)
we have

Xp
Z|qu| ) SRS SH 4 | By P (). (23)

q | i q|
Integrating in y over B(z, R%+8) for each 1 <i <k, we see that, for x € B(z, R%+8),

k k ~

1
2 dk Xp
I1 xB(z,Rum)(ZlEqF) < R°R' 1‘[(2— | Fiql ) (x). (24)
i=1 q 2 i=1 |Pigl
Now, integration in x over B(z, R27¢) yields
k % 4 k xp %
2 ceEpy
XB(z,R1/2+¢ ( |qu| ) H SRR+ ( |qu| ) . (25)
1:[1 e ; : 1:[1 ; |Pi ql L2/E=D(B(z,RY/2+9))
Combining this with (21) we have, for any large M > 0,
k
[1#
i=1 IIL2/%=D(B(z,4/R))
k ~ 1 k
o XP 2
g ( “L |F,q|2) +8M [TIF N2, 26)
il:[l Z |Pz q| L2/k=D(B(z,R1/2+¢)) 1.1:[1

We now cover B(0, R) with boundedly overlapping balls B(z, +/R) and use the above inequality for
each of them. Then we get

o

< §-2c¢
L2/&=1D(B(0,R))

k
+6M=C TT I 2.

L2/ (B(0,2R)) e

ﬁ(Z i |qu|2)1

i=1 q| 7‘1|

i=1
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Here we have an increased ¢ because of the overlapping of the balls B(z, R%"'"’") in the right-hand side.
Since 3", [ Fig 13 ~ || F;||3. for (20) it is sufficient to show

ﬁ(Z Lty ) SoTrEe 1‘[(2 ||qu||2)

ici Vg | qu L1/:=1D(B(0,2R)) paliet

By rescaling this is equivalent to

H(Z |X1fqu| ""’)

i=1

SoT¥R* H(Z I fi q||1) 27)

LV/&=1(B(0,2)) im1

LetZ; = {q : supp F; Ng # @}, 1; CZ; and T; 4 be a finite subset of R?. Allowing the loss of (log R)€
in bound, by a standard reduction with pigeon-holing it suffices to show

ﬁ(z 2 XP,».q+r) SU‘ER“IEI(Z > lPl-,q+r|). (28)

i=1\qel; 1€T; 4 L1/#=D(B(0.2)) i=1\gel; 1€T; 4

We write x = (u, v) € IT x IT+(= R?). Then the left-hand side is clearly bounded by
k

n(z )3 xPi,q+,<-,v>)

i=1 “qel; 1€Ti 4

sup
vell+

L1/*=D(B(0,2))

where B (0, p) C R¥ is the ball of radius p which is centered at the origin.
For v € IT+ let us set
(Pig+1)’ ={u:(u,v)ePig+r1}

Then (P; 4 + 7)¥ is contained in a tube of length ~ 1 and width C R_%, with axis parallel to N(§; 4).
This is because the longer sides of P; 4, except the one parallel to N(§; 4), are transversal to IT. More
precisely, we can show that if &, is sufficiently small and N is large enough, there a constant ¢ > 0,
independent of ¥ € &(go, N), such that, for w € (Tg, ,(N~'(I1)) & span{N(S,-,q)})J',

A(w,IT) >c¢ > 0. 29)

Since (13) is satisfied whenever §; € I';, i =1,...,k, we know N(§1,4), ... , N(&k,q4) which are, respec-
tively, parallel to the axes of tubes (P1,q +7)", ..., (Pk 4 + 7)Y, satisfy | VOI(N(§1,¢), ..., N(§x 4)) 2 0.
Also note that |Pi”’q + 7| ~ | Pi 4|. Hence, by the multilinear Kakeya estimate in R* (Theorem 3.7) it
follows that

k

1‘[(2 Xpry el v))

i=1

ot H(Zm o el).

Ll/(k—”(E(o,z)) i=1

This gives the desired inequality (28).
Now it remains to show (29). By continuity, taking sufficiently small ., we only need to show (29)
when ¥ = Yo since | — Yol cn (sa-1y < €o. Though it is easy to show and intuitively obvious, we
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include a proof for clarity. By rotation we may assume 1N {x; = —1} = {(y.a,—1) : y € R¥~1} for
some a € R~ Since II contains the origin, IT can parametrized (except for IT N {x; = 0}) as follows:

s(y,a,—1), seR,y e Rk L, (30)

We may assume T'; (§) N (N"!1(IT) + O(8)) # @ because otherwise F; = 0 and there is nothing to prove.
Since N(I') N IT = @ if |a]| is large, we may assume that |a| < C for some C > 0 and note that §; , € I' ().
Furthermore, it suffices to show that

TN (T, ,(N"1(IT)) @ span{N(&4)}) " = {0}, 31)

which implies £ (w, IT) > 0 if w € (T, ,(N~!(IT)) @ span{N(Ei,q)})L. Then, by continuity and compact-
ness (29) follows. We now verify (29) with ¢ = 1,. By rotation we may assume a = (0,...,0,a) =:
0,a) e RAF—1 xR, Using the above parametrization of I1, we see that

IT = span{ey,...,ex_1,(0,...,0,0,a,—1)}.

The normal vector at (x’, |x'|2/2) € R4~! x R is parallel to (x’, —1). Hence, if (x’, |x’|2/2) € N~1(II),
that is, (x’, —1) € I1, then x’ takes the form x” = (y, @) because of (30). Hence, it follows that N~ (1) =
{(.0.qa, %(lyl2 + |al?))}. Then, if & 4 = (y.0.a, %(lyl2 + a?)), we have Ts, (N~1(IT)) is spanned
by y1 =(1,0,...,0,0,y1), y2=(0,1,...,0,0,0,¥2), ..., yx—1 =(0,0,...,1,0,0, yr_1). For (31)
it is sufficient to show that 98 := I1 N (span{(y,0,a,—1), y1...., yk—1})= = {0}. Let w € B. Then,
since w € spanf{eq,...,er_1, (0,...,0,0,a,—1)}, we may write w = (c1,...,¢ckr_1,0, cra, —cg). Also,
wyr=--=wyr_1=w-(y,0,a,—1)=0gives c; =---=c; =0. So, v =0 and, hence, we get (31). O

2D. Scattered modulation sum of scale . When the Fourier transform of a given function f is supported
in a ball of radius o, then f behaves as though it were constant on balls of radius o —!. This observation
has important role in Bourgain and Guth’s argument [2011] and is widely taken for granted without being
made rigorous. There seems to be several ways which make this heuristic rigorous; see [Tao and Vargas
2000b; Tao 1999]. For this purpose we make use of the Fourier series expansion.

Fix o > 0 and large positive constants M = M(d) > 100d and Cps which are to be chosen to be large.
For [ € 6~17% we set

A= A1(0) =Cu(I+[olD™, 7 f(x) = fx—1). (32)
For o > 0, we define [F]q, |[F]|s (the scattered modulation sum of o-scale) by
[Flo)= Y AluF@L Flle@) =Y ApAplu 4 F@)). (33)
leg—174 l1,l,eoc—174

Lemma 2.13. Let £y, xo € R%. Suppose that F is a function with F supported in q(§o,0). Then, if
X € cI(xo, %)
|F(x)] = [Flo(x0) < [[F]lo(x).

It should be noted that the inequality holds regardless of &g, x¢, and o.
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Proof- Let a be a smooth function supported in [—7, 7]¢ and a(x) = 1if |x;| <1, i =1,...,d. Set

Ax.§) =a)a()e™E.
Since |8‘gA| < Cy for any multi-indices «, by expanding into Fourier series in £ we have
a(x)aE)e™ =" aj(x)e . x. g e[-m 7], (34)
lezd

while a; satisfies |a;(x)] < Car (1 + |I|)~™ for any large M > 0. On the other hand, from the inversion
formula we have
F(x) = (27.[)—01 / ei(x—xo)'éoei(x—xo)'(f—fo)eixofﬁ@:) dE§.

Hence, since x € q(xo, Cl,) inserting the harmless bump function a, we may write

£E—&o
o

F(x) = 2r) 4e!x—%0)40 f A(U(x—xo), )e"xofﬁ(g)dg.

Using (34) we have

F() = @m0 3 ao(x—xo)) [

lezd

ST 30 fg) it

Then it follows that

IFO)I< Y AlgFxo)l = ) ApApltg 4 F)L. (35)

leo—174 l1,lr,ec—174

The second inequality follows by applying the first one to each t; F with the roles of x, x¢ interchanged. [

2E. Multiscale decomposition. We now attempt to bound part of Ty f with a sum of products which
satisfy the transversality assumption, while the remaining parts are given by a sum of functions which have
relatively small Fourier supports. The first is rather directly estimated by making use of the multilinear
estimates and the latter is to be handled by Proposition 2.5, the induction assumption and Lemma 2.6.
In what follows, we basically adapt the idea in [Bourgain and Guth 2011]. However, concerning the
decomposition in that paper, reappearance of many small-scale functions in large-scale decomposition
becomes problematic when one attempts to sum up resulting estimates. For the adjoint restriction estimates
this can be overcome by using L°°-functions, as was done in [Bourgain and Guth 2011]. But such an
argument doesn’t work for the multiplier operators and leads to a loss in its bound. To get over this, unlike
the decomposition in [Bourgain and Guth 2011] where one starts to decompose with d-linear products
and proceeds by reducing the degree multilinearity based on dichotomy, we decompose the multiplier
operator by increasing the degree of multilinearity in order to avoid small-scale functions appearing inside
of large-scale ones. This has a couple of advantages. First, this allows us to keep the function relatively
intact in the course of decomposition so that we can easily add up decomposed pieces to obtain the sharp
L? bound. Secondly, the decomposition makes it possible to obtain directly obtain the L? — L? estimate.
Hence we don’t need to rely on the factorization theorem to deduce L? — L? from L°° — L?. (The same
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is also true for the adjoint restriction operators.) Hence, we can obtain the sharp L? bounds for multiplier
operators of Bochner—Riesz-type, which lack symmetry.

2E1. Spatial and frequency dyadic cubes. Let 0 < e, < 1, 1 K N, ¥ € &(g,, N), and Ts be given
by (9). Let k =k (&0, N) be the number given in Proposition 2.5 so that (11) holds whenever 0 < ¢ <k and
¥ € B(eo, N). Let m be an integer such that 2 <m <d —1, and o1, . . ., 05, be dyadic numbers such that

8 Loy K-+ K o1 K min(k, 1). (36)

These numbers will be specified to terminate induction. We call o; the i-th scale.

Let us denote by {q’ } the collection of the dyadic cubes ¢’ of side length 20; which are contained in 1 d
(so, q' denotes the member of {q'} and the cubes g’ are essentially disjoint). Rather than introducing a
new notation to denote each collection of g, we take the convention that {g’} denotes the collection of all
dyadic cubes of side length 20; contained in /¢ if it is not specified otherwise. For each i-th scale there
is a unique collection so that there will be no ambiguity, and we also use ¢’ as indices which run over the

Jo' =14 (37)

qi

set {q' }. Thus, we may write

For the rest of this section, we assume that
supp f C %I d
Since f = Zqi fq,-, fori =1,...,m, we write

Tsf =) Tsfy. (38)
qi
Clearly, we may assume that g’ is contained in a Co;-neighborhood of the surface I" (/) because T fqi =0
otherwise. So, in what follows, q', q7,...,q;; and g, denote the elements of {q'}.
For convenience we extend in a trivial way the map N defined on T'(y/) to the cube 7¢ by setting, for

f=¢ el

n(Z.t) =N ¥ ().
This extension is not necessarily needed in what follows because we only consider a small neighborhood
of T'(y). However, this allows us to define a normal vector for any point in /¢ and makes exposition
simpler. This definition of n agrees with the one given in the next section.

Definition 2.14. Let k be an integer such that 1 <k <m and fix a constant ¢ > 0. Let q’l‘, cee, qiﬂ e {q~}
(k-th scale cubes). We say q’l‘, q’2‘, e q]]§+1 are (01,02, ...,0r)-transversal if
Vol(n(§1).n(52), ... .n(5k+1)) = co102 -+ Ok, (39)
whenever &; € qf.‘, i =1,...,k+1. And we simply denote this by “q7, q’2‘, ey qu trans” and say qll‘,
q’zC e, q’,ﬁ 4 are transversal, omitting dependence on 01,03, ..., 0.
Let us set 1
Ml - 1= 1’ , M
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We denote by {Q} the collection of the dyadic cubes of side length 2M;, which covers R? (so, Q' again
denotes a member of the sets {Q'}). We write'

o' =r%
0

Since the Fourier support of T fqi is contained ¢, it may be thought of as a constant on £’ by invoking

Lemma 2.13 with 0 = 0;. Since the scale o; is clear from the side length of the cube g, we simply set

[Ts foil == [Ts foiloy  |Ts foill := [[Ts fyillo -

(40)

2E2. 01-scale decomposition. Bilinear decomposition is rather elementary. Fix x € R¢. From (38),

T £ < 31T fyr ().

ql

We denote by qL = ql(x) a cube q! € {g'} such that |T5fqi (x)| = max; |T3fq>1k(x)|. (There may be

many such cubes but qL denotes just one of them.) Then we consider the following two cases separately:

D 1Ts £ (0] 10091 Ts £ (). Y [Ty fon ()] > 1007 |Ts f1 (x)].
q1 ql

For the second case
Yo AT fp ()] <509 Ts fp ()] <270 Y | Ts fa (0)).
dist(q!,ql) <100

ql
Hence there is q] € {q'} such that dist(q}, q1) > 1007 and

—(d— —(d— 1
o 1Ts fp () S 07 CTONTs £ (0] < 07 VT £ (0 Ts £ ()12,
ql
From these two cases we get
_d=1

D 1T fyr (0] < max |Ts fu (1) + Coy > max

q
Cl1

1
| Ts f1 ()T fo1 (x)]>.
dist@@lad)zor M 12
Using the imbedding £ C £°°, Proposition 2.5 and Lemma 2.6 give

I 73 ol < (173 1 )
ql

Hence, combining this with (41), we have

S

N =

< (Z AOT28)7] ||,1;)
ql

1
ITsfllp S AGT8) I Flp+07C  max  |Ts £y Ts iy 13-
dist(q,95)201 2

We now proceed to decompose the bilinear expression appearing in the left-hand side.

T Here we take the same convention for {3’} as we do for {q'}.

S A@T OIS p-

(41)

(42)

(43)
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In the following section we explain how one can achieve trilinear decomposition out of (43) before we
inductively obtain the full k-linear decomposition which we need for the proof of Theorem 1.1. Once
one gets familiar with it, extension to a higher degree of multilinearity becomes more or less obvious.

2E3. o3-scale decomposition. Suppose that we are given two cubes q{ and q% of first scale such that
dist(qi, q;) Z o01. Fori = 1,2, we denote by {qlz} the collection of dyadic cubes ql.2 of side length o,
contained in qi1 such that

d-Ue. -1 ()
a7
We also denote by {q?} the set {q%} U {q%}. Then it follows that
Ts /) =ZT5fqiz, i=1,2. (45)
2
49

We may also assume that q%, q% are contained in the Co,-neighborhood of I'(y) because T} fq%, Ts fq%
are zero otherwise.

Decomposition from this stage is no longer as simple as in the o;-scale case. We need to use spatial
localization in order to compare the values of the decomposed pieces. This makes it possible to bound
large parts of the operator with transversal products.

Let us fix a cube Q2 and x¢ be the center of Q2. Let q3, € {q3}, 95, € {q5} be the cubes such that

[7s /2, 1(x0) = max([Ts f2](xo0),  [Ts.fp2 1(x0) = max[Ts f.2](xo).
a1 92

Let us define AZ C {q?}, i = 1,2, by
A} = a7 < [T5 f2)(x0) = 039 max ([T /2 1(x0). [T /3,1 (x0))}.

Using (45), we split the summation to get

TsfuTsfy= ). TslpTs/pg+ ). Tsfpls/a. (46)

(42,93) €A1 XA (42,03) €A1 x A2
Since there are at most O(o, 2(d_l)) pairs (q%, q3), the second sum in the right-hand side is bounded by
Yo TsfpITs fp(0)] < 0f max((Ts fp](x0))>. (47)
(42,03 €A 1x A2 1

For a cube q we denote by ¢(q) the center of q. Let TT = I1(q3,, q3,) be the 2-plane which is spanned
by n; = n(c (q%*)), ny, = n(c(qg*)), and define

N =M% qb,qd) = {g% € A2 U A2 : dist(n(q?), TT) < Co)}. (48)

Clearly, Vol(ny,n,) = o1 and dist(n(q?), 1) = o, if q> &€ M. Since o1 > 07, if g% & N, then
Vol(ny,ns,n(§)) = o105 for £ € g% Also, n(qiz*) Cn; + O(o2), i =1,2. So, it follows that

Vol(n(é1).n(62).n(§3)) 2 0102 (49)
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if & € q3,, & € q3,, and & € q*> ¢ M. That is, q2,, q3,. q° are transversal. Hence, we split
Z(q?,qﬁ)eAlez Ts Ji2 Ts oz into

Y BfpWTsfp+ Y Tifp)Ts /(). (50)
(43,93) €A1 X A2 (42,93) €A1 X A2
q%a‘l%em q% or q%&")’t

Each term appearing in the second sum can be bounded by a product of three operators which satisfy the
transversality condition. Indeed, suppose that (qf, q%) € A1 x Ay and q% ¢ N. The case qf ¢ 9 can be
handled similarly by symmetry. Since [T} fq%] (xo) > 022d[T5 fq% ](x0), we have

2
3

[T5 £21(x0)[T5 fi2] (x0) = ([T fi2, 1(x0)[Ts £,21(x0)) * ([T5 £,21 (x0) [T fqgl(xo))%

= 0—2_%([Tqu%*](XO)[TSfq%*](XO)[Tqug](XO))%-

Hence, from this and (49) it follows that
> Ts £ () Ts f2 (x)

(43,93)€A1 X A2
q% or q%¢‘)’t

3 3
<0¢ ) (H[Tsfqiz](xo))- (51)

,a3.03 trans \1=1

We combine (46), (47), (50) and (51) to get, for x € 02,
| Ts fq1 () T fo1 ()]

=of (malTfpl o)+ 30 T/ /()

(a3.93) €A1 XA
q7.93€N

vor€ Y (f[[Tsfqg](xo>)§.

2 2 2 =
q71,95,95 trans ! 1

Using Lemma 2.13 again, we have, for x € Q2,

T3 fyy (T3 Sy (0] = 0 (max| [Ty fo]|(6))°
3 3
Y npwngere ¥ (TTimgem) .

(q%,q%)eAlez q%,q%,q% trans =1
q3,93€N

Taking L% on both sides of the inequality over each 22, summing along 92, and using Proposition 2.5
and Lemma 2.6, we get

N1

y2
Z TsfpTs /g2

) )
LPr/2(02
2.02CIN(Q2.q]ab) @

175 1 Ts fipll g < (A3 28211 /115 + (Z

QZ

2
+05¢ sup  max 175 (11 f2) Ts (v2 f) Ts (3 Sl 5. (53)

T1,72,73 q7,93,93 trans



SQUARE FUNCTION ESTIMATES FOR THE BOCHNER-RIESZ MEANS 1557

where [91](Q2, q1. q) is a subset of 9(Q?, q}. q3). Here, for simplicity we now denote ;, / by 7; f just
to indicate translation by a vector. The precise value of /; is not significant in the overall argument. To
show (53), for the first term in the right-hand side of (52) we may repeat the same argument as in (42). In
fact, by (33) and the rapid decay of A;T combined with Holder’s inequality to summation along /, !, and
using Proposition 2.5 and Lemma 2.6 we have

Hnégx I1Ts 211, = sgszn;gx ITs (w2 f2)l], S AT £ -

For the third term of the right-hand side of (52), thanks to (33) and the rapid decay of A;, it is enough to
note that there are as many as O(o, € transversal ql, q2, q3
We combine (53) with (43) to get

1Ts fllp < Ay 28 £llp + 07 € A0z 28) 1 f

1
+0; "~ sup max

71,72 ql q2 trans

Y G@fa)Ts(fp)
9% 7 q7Ca1, 43C0;
a7,95 C[M(Q%,a1,45)

1
+07C05C sup max | Ty(mfp) a2 f) Ts(s fg) - (54)

T1,72,73 C|1,q§,q3 trans

Lp/z(QZ))

Here [91](Q2, qi, q%) also depends on 71, 72. We keep decomposing the trilinear transversal part in order
to achieve a higher level of multilinearity.

2E4. From k—transversal to (k+1)-transversal. Now we proceed inductively. Suppose that we are given

dyadic cubes q , c|’2C LA qi_l of (k—1)-th scale which are transversal:

Vol(r(§1).n(82), . ... n(§k)) = co102 -+ Oy (55)
whenever §; € qf‘ 1i=1,...,k. As before, we denote by {q{-‘} the collection of dyadic cubes of side
length 20 contained in qf.‘_l such that

Udf=af"" i=1.... .k (56)
k

and we also denote by {q¥} the set U?:l {qf.‘ }. Hence,

k
HTafqlk—l—l_[(ZTafk) Z ]_[(Tsf ). 57)

i=1 i=1 kl—l

.....

Fix a dyadic cube QF of side length 2M; and let xo be the center of Q. Fori =1, ...k, let qf* € {qf.‘}
be such that

[75 /qx 1(x0) = max[T fox](xo)

i

TNote that the sequence is independent of 2.
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and we set, fori =1,...,k,

AF = {af T3 f) o) = ()" max [T £ 1(xo)}.
Then, it follows that

k
> [ 1175 f51(x0) < max(Ts fys] (o). (58)

@t Ti AF 151
Let ny, ..., n; denote the normal vectors n(c (q’f*)), ...,n(c (qi*)), respectively, and let
m* = kX, g% =1L gk=L .. gk
be the k-plane spanned by ny, ..., n;. Now, for a sufficiently large constant C > 0, we define
=" qf a5 D) = dist(n(d). TTF) < Coyel. (59)

By (55) it follows that if q{-‘ Z M, (39) holds whenever &) € qll‘*, o & € qlli* and &4 € qf.‘. Hence,
q’f*, e qi*, qf.‘ are transversal.

We write
k k k
> [[5re= X [[5x+ X [17s/y. 60
(@) elTio, AF 151 (af,afelTie, A 1=1 (af,af)elTie, A 1=1
q]f,...,qfe‘ﬂ q{-‘g!‘)? for some i
Consider a k-tuple (q’l‘, cenq k) which appears in the second sum. There is a q ¢ 1. By the same
manipulation as before, we get
k ,2 k
_k _k
[ 1175 1 (x0) < 0 © H([Ts S JX0) T ([T f] (x0)) 75T
i=1 i=1
Since q’f*, cee, qi*, qf.‘ are transversal, by Lemma 2.13 we have, for x € 9F,
k+1 .
> H Tsfu)| 20 ¢ > [T/ (61)
(q’l( ,,,,, qﬁ)eﬁf;l Af.‘ i=1 q]f,...,q£+] trans =1

qk &N for some i

Combining (58) and (61) with (57) and (60), and applying Lemma 2.13 yield, for x € 0k,

k
[17s /1)
=1 . k+1 k
S(II;QXI[Taqu]I(X)) +o,. ¢ Z ]_II[Tsfk]I(X) ‘ Z [17s /0]

ql ..... qk_Htrans =t gk qy € i=1
[‘ﬁ](Dk,Cl] l’ ,qk ])
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where [D1](QF, q’f‘l, s qi_l) is a subset of M(QF, q’f_l, ey q’,ﬁ‘l). After taking the (p/k)-th power
of both sides of the inequality, we integrate on R¥, and use Proposition 2.5 and Lemma 2.6 along with
(33) to get

k+1 =T
1‘[T5fk ,(x) SAOCONS lpFoiC  sup max | [ 75 £0)
i=1 TlseesThk+1 ql, g4y transll ;4 Lp/(k+1)
2 1
P
5> I S s C771 W
0k q/f ..... qﬁe i=1 L Q%)
[RU[CO LT
2ES5. Multiscale decomposition. Fork =2,...,d — 1, let us set
1
D
Smkf= sup max ( Ts(ti f « ) ) .
T] s Tk qlffl ..... q//gfltrans ; Z l_[ l q' Lr/k(Qk)

qhcgk—ti=1
af s..oaf €[N(QF)

Here [D](QX) depends on 71, . .., %, and q’f‘l, e, qi_l, but n(q*), g% € [M](QX), is contained in a
k-plan. Starting from (54) we iteratively apply (62) to the transversal products to get

ITsf o < Z 01 GA O f |l
k=1 m+1
+ Z ok__climkf +ol_c sup max l_[ Tsti fql

k=2 Tl Tl 4] e qm_Htrans ie1

(63)

Lp/(m+1)

2F. Proof of Proposition 2.3. For given 8 > 0, we need to show that AB(s) < C for0 <s < 1if
P > po(d). Let ¢ > 0 be small enough such that (100d)~!8 > ¢, and choose a small &, > 0 and
N = N(e) large enough such that Proposition 2.10 and Corollary 2.12 hold uniformly for ¥ € &(e,, N).

Let0<s <8 <1,andletoy,...,o, be dyadic numbers satisfying (36). Since A(§) < C for§ = 1
and s < 0;28, we see

d=1,d
A(0;28) < A(0g *8) X (0.10-21 (0 28) + C < (o,;za)—T'+rﬂ AB(s) +C. (64)
By Proposition 2.10 and Lemma 2.6 we have, for p > 2(m + 1)/m,
mi1 d__d—1
sup max [] 75w fq, S om) 8T8 || fllp, (65)
Tlees T+1 q] ..... qm+1 trans i=1 Lp/(m+1)
which uniformly holds for ¢ € &(go, N).
We have two types of estimates for oMk f. Since q]f L q’]g_l are already transversal,
k
| x Mnels 2 ||
qf‘Cq{-‘_l i=1 q’f ..... q’,ﬁ trans (=1

¥ ,..ak @)
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Here we slightly abuse the definition “trans” and “q’f, s qllg trans” means (55) holds if & € qf.‘, i =

., k. Since there are as many as O(o; €Y k-tuples (q’f, cees qi) and the above inequality holds
regardless of QF, we get

k
MS o€ sup  max [ Ts(wife)
-1 g

Tlseees Tk q’f,...,qé trans ||

Since q’f ey qi are transversal, by Proposition 2.10 (also see Remark 2.8) and Lemma 2.6, we get, for
p=2k/ (k —1),

l—[ T (Tl

i=1

Hence, for p > 2k /(k — 1), we have the uniform estimate for ¢ € &(go, N)

<(ol 1) Ce85™ ;_Sﬂllrzf 15 S0y G850 £

i=1

MEf <o 85T ¢ £l (66)

On the other hand, fixing 7y, ..., 7%, ql_1 R | k_l trans, and QF, we consider the integrals appearing

in the definition of MM . Let us write Q% = q(z, 1/0}). Using Corollary 2.12, for 2 < p < 2k/(k — 1),
we have
kC k 1 i=1

LI E[‘ﬁ] (k)

Since [M](QF) c N(QF, q]f_l, qk_l) it is clear that if q € [‘ﬁ](Qk) then qf-‘ Cc N7I(IT) +

O(oy) for a k-plane IT. Since qk 1,...,q£ ! are transversal and q C qk =1,

<0k | Ok l_[

LP/K(24) =1

> 1‘[T5<rlfl)

( Z |5 (zi fr )] ) PB(ZC)H (67)

af e[ (Qk)

Lk, we
know Zq’fem(nk) Ts (11 fq] K)y vens ok en(ak) Ts (rquﬁ) satisfy the assumptions of Corollary 2.12
(Proposition 2.11) with § = o} and 0 = 01 - - 0% _1. Hence, Corollary 2.12 gives (67).
Recalling that the qf-‘ are contained in a Coy-neighborhood of I'(/), we see that #‘ﬁ(i)k )is < a,i -k
So, by Holder’s inequality we have
'p

H > 1‘[ Ts (v /g )
Here we bound o1, ..., 0r—1 with o;_; using (36) and replace C, with a larger constant C, since ¢ is

=

1
S0y 7
Lp/k(Qk) 1<i<k

(ZITs(nf 1) 2o
q

qfcqf~t =1

fixed. By using the rapid decay of p we sum the estimates along 0k to get
1

M f <0Gy TNET :P”(Z|T5(Thqu)|p)p (68)
qk

p

By Proposition 2.5, Lemma 2.6, and (64) we get, for 2 < p <2k /(k —1),

+M_M

B _d=1,d_ _
mk £ < (akclak 2 N R ﬂAﬂ(S)‘i‘UkC)Hpr-
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Here we also use (100d)™'8 > ¢. So, if p >2Q2d —k +1)/2d —k —1),
M f < (03 G086~ T TP AP () + 0 ) N
for some o > 0. Combining this with (66), we have for some o > 0

_ _d—1
MK f < (0,C8 2 +5 4o Cols ﬂAB(S)-FUk Sy
provided that

_(20d—k+1) 2%
P=MM =T "%k—1 'k-1)

Since (100d)~!8 > ¢ and po > 2d/(d —1), from (64) we note that A(c _28) < 00‘8_; ﬁ_ﬂAﬂ ().
Thus, by (63), the above inequality, (64), and (65) we obtain

m
_ _ _d—1_,d__ _ _d—1_,d_
15 fllp < Y (0 Gof AP () + 0 )6~ Z To | fllp + 0, S8 T T2 7P 11, (69)

for some o > 0 provided that

202d —k+1) 2k
2d—k—1 "k—1

2>m + 1
), k=2.....mand p> 2D (70)
m

p Zmin(

Since the estimates (65)—(68) hold uniformly for ¢ € &(e,, N), so does (69). Taking supremum along
Y and f, we have

A@B) < (Z CopGof AP (s) + Co,;C)s—"z“+‘£-ﬂ.

— —1_d
By multiplying 575 to both sides, 8%_5+BA(8) <> Cok__clol‘é‘AB (s)+ CJ,;C. This is
valid as long as s < § < 1. Hence, taking supremum for s < § < 1 yields

AB(s) < Z Coy. O’I?.Aﬂ(s) +Co,C
k=1
if (70) is satisfied. Therefore, choosing 07 < -+ - K g, successively, we can make ZZ’ZI C (’k_—cl 0,‘;‘ < %
This gives the desired AP (s) < C 0,,,C provided that (70) holds.
Finally, we only need to check that the minimum of

2 1 22d —k+1) 2k
P(m) =max($,k=n;?§mmin( (2d—kj_1 ),k_l)), 2<m<d-—1

is po(d) as can be done by routine computation. |

Remark 2.15. The minimum of P is achieved when m is near 2d /3. So, it doesn’t seem that the argument
makes use of the full strength of the multilinear restriction estimates.
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3. Square function estimates

In this section we prove Theorem 1.2. We firstly obtain multi(sub)linear square-function estimates which
are vector-valued extensions of multilinear restriction estimates. Then, we modify the argument in
Section 2F to obtain the sharp square-function estimate from these multilinear estimates. Although the
basic strategy here is similar to the one in the previous section, due to the additional integration in ¢ we
need to handle a family of surfaces. This argument in this section is very much in parallel with that of
the previous section.

3A. One-parameter family of elliptic functions. As before, for 0 < g, K % and an integer N > 100d,
we denote by & (o, N) the class of smooth functions defined on 7 d=1 % I which satisfy

[V = Vo —tllena-1xr) < €o. (71)
This clearly implies that, for all (x,7) € / =1y,
A (x,t) €[l —eo, 1 4+ &o]. (72)

For ¢ € (g0, N) and zg = (o, 1) € %Id, define
&2

31 (zo0)
where HY, = (/HW (- 10))(C0))~ . Then we have the following.
Lemma 3.1. Let zg € %Id and € B(go, N). There is a k = k(go, N) > 0, independent of V, (o, to,
such that yZ  is contained in B(eo, N)if 0 <e <k.
Proof. 1t is sufficient to show that |8°‘8ﬂ (V2,8 1) —¥o(§) —1)| < Ce, with C independent of ¢ €
B(go, N), if || + B < N and (¢,1) € Id

Let0<e < 1 JIf (6 1) € 19 and |a| + 28 > 2, trivially |8“8’3(1ﬁ20(§ t)—Yo(C,t)—1)| < Ce because
zo = (8o, t0) € 5 Id Thus, it is sufficient to consider the cases § =1, |¢| =0and § =0, 0 < || < 2.

The first case is easy to handle. Indeed, from Taylor’s theorem and (72)
&2

0u(02,6.0) = o =) = @)™ (309 (50 4 et 4 5 ) < Buv o) = 0
To handle the second case, we consider Taylor’s expansion of ¥ in ¢ with integral remainder:

W(é-v Z‘) = W(; tO) + 3t1ﬂ(§, tO)(Z _ZO) + Rl(; t)v

ve 0 = e—z( (zo et 1o+ ) Y (z0) - sV;w(Zo)H‘z’i)é)

where

1
RiG.1) = (1 — 1) /0 (1= )Y (& (¢ — to)s +1o) ds.

The change of variables t — to + &2(0, ¥ (z0)) " 't, £ — Lo + 87{?(); gives

&2t
(Zo ety offoF 3t1/f(20))

v
=é W( t0)§0(§)+1ﬁ(20)+8v§1p(20)7{ §_|_8 3t¢(§o+87—[20§,t0)

0t ¥ (z0)

1+ R(&, 1),
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where ¥ (-, to)go is defined by (8) and R(¢, 1) = R1(&o +8’H'zp0§, to+€2(d; ¥ (z0))~'t). Hence, it follows
that v ;

0 eH,.C, ty) — z
Ve Vot = Y (- 10)5 (©) — Yo + ¥ (S0 + tzlzizoo)) 1V (20)
Since ¥ (-,20) —to € B(go, N) and (Y (-, ) —to)e =y(- to)e , we have |8“(1ﬁ( to)‘9 — o) <Ce
on 14 for || = 0,1,2 (similarly to the proof of Lernma 2.1). By (72) and the mean Value theorem
we also have (9,1 (z¢))™! ag(atw(go + E’HZOC, 10) — 0: ¥ (z0))t = O(e) in CN (1471 for || = 0, 1, 2.
Note that

t+&2R(E, ).

2.2 1
fﬁ(@,z):@ﬁ/ (1—5)07 (¢o + eHY L. e(3: Y (z0)) ™' ts + to) ds.

Thus, again by (72) it is easy to see that 8"‘ (672R) = 0(¢2112]) for any «. Therefore, combining the all
together we have |3°‘(w20( 1) — Yo —t)| <Ceon 197! for |a| =0,1,2. |

3B. Square function with localized frequency. Abusing the conventional notation we denote by m(D) f
the multiplier operator given by n@)\]’ &) =m() f (&), and we also write D = (D’, D) where D’,
D, correspond to the frequency variables ¢, T, respectively.

In order to show (4), by the Littlewood—Paley decomposition, scaling, and further finite decompositions,

H( H_s )é
1—¢2

for some small ¢ > 0. And by decomposing f , which may now be assumed to be supported in S d-1 4

it is sufficient to show

R“f(X) =Cllflp

p

O(g?), and rotation we may assume f is supported in B(—e , ce?) with some ¢ > 0. Hence, by discarding
the harmless smooth multiplier, the matter reduces to showing

[1(Da + V> =ID"*)5 flza—ezazenll, < CIf llp-

By changing variables in the frequency domain, Dy — Dg+1, (D', Dg) — (¢D’,*Dg) and t — &%t +1,
this is equivalent to

[1(Da =¥ (D", ONE 2e(D) 201y |, = ClLf N (73)

where ¥, (£,1) = e72(1 — /1 + 262t + 412 — £2]¢|2) and y, is a smooth function supported in a small
neighborhood of the origin. Clearly, v/, satisfies (71) with e = C&? for some C > 0. Consequently, we
are led to consider general ¥ € &(g,, N) rather than the specific ¥,

Let us define the class £(N) of smooth functions by setting

EN)={neC®U*xI):|Inllengaxpy <1, L <n=1}.

D=

Let ¢ € (g0, N) and n € E(N). For 0 < § and f with f supported in 179, we define S5 = S5 (¥, ) by

n(D.1)(Dg —y (D', l)))f
)

=

Ss f(x) = H¢( (74)

L%(I)'
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Compared to v, the role of 7 is less significant but this enables us to handle more general square functions
(in particular, see Remark 3.3). By dyadic decomposition away from the singularity, the matter of showing
(73) is reduced to obtaining the sharp bound

1S5 £ 1, <C87~ 2 fll,. £>0, (75)

when f is supported in a small neighborhood of the origin. This is currently verified for p > 2(d +2)/d
[Lee et al. 2012] by making use of the bilinear restriction estimate for the elliptic surfaces. The following
is our main result concerning the estimate (75).

Proposition 3.2. Let ps = ps(d) be given by (5) and supp f C 5 Id If p>min(ps(d),2(d +2)/d) and
o Is sufficiently small, for ¢ > 0 there is an N = N(¢g) such that (75) holds uniformly for ¢ € (g0, N),
ne&(N).

Proof of Theorem 1.2. By choosing a small & > 0 in the above, we can make ¥, be in &(go, N) for
any g9 and N. Hence, Proposition 3.2 gives (75) for any ¢ > 0 if p > min(ps(d),2(d + 2)/d). Hence,
dyadic decomposition of the multiplier operator in (73) and using (75) followed by summation along
dyadic pieces gives (73) for o« > d /2 — d/ p. This proves Theorem 1.2. |

Remark 3.3. As has been shown before, for the proof of Theorem 1.2 it suffices to consider an operator
which is defined without 7, but by allowing 71 in (74) we can handle the square-function estimates for the
operator f — ¢((1—|D|/t)/8) f, which is closely related to smoothing estimates for the solutions to
the Schrodinger and wave equations; for example, see [Lee et al. 2012]. In fact, Proposition 3.2 implies,

(b))

if p > ps(d). Indeed, by finite decompositions, rotation and scaling, as before, it is sufficient to consider

fore >0,

<82757°C| £l (76)
p

the time average over the interval I, = (1 — &2, 1 + &%) and we may assume that f is supported in
B(—eg, cg?). Writing

L&)/t =12+ ENT @ = V2 = L) (@ + Vi = [¢]?)

for £ € B(—eq, cs?), the same change of variables D; — Dg + 1, (D', Dg) — (¢D’,¢?Dy) and
t — &2t + 1 transforms ¢ ((1 —|€|/1)/8) to

¢(’7(§J)(T - Wbr))
£728/2

with a smooth 7 which satisfies n € (1 —ce/2, 1 + ce/2). Hence, we now apply Proposition 3.2 with
sufficiently small € to get (76).

As before, in order to control the L? norm of S5 we define B(5) = B, (§) by

B(8) = sup{||Ss (¥, ) fllLr : ¥ € (e, N), n€ EN), | fllp <1, supp f € 119},
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As before, using Lemma 2.9 it is easy to see that B(§) < C if § > 1, and B(5) < C§~¢ for some ¢ > 0
otherwise (for example, see the paragraph below Proposition 3.6). We also define for 8 > 0 and § € (0, 1),
d— d
BE@S)=BE@S)= sup 5= 7P B (s).
§<s<1

Thus, Theorem 1.2 follows if we show B# (6) < C for any B > 0. As observed in the previous section,
the bound for Sg f improves if the Fourier transform of f is contained in a set of smaller diameter. The
following plays a crucial role in the induction argument (see Section 3F).

Proposition 3.4. Ler 0 <8 < 1, ¥ € €(e0, N), and 1 € E(N). Suppose that f is supported in q(a, €),
1046 <eg< %, and a € %Id. Then, if € > 0 is small enough, there is a k = k (g0, N) such that

1.1 _
IS5 (. m) flp < Ce? "2 Byp(e728)I1 /Il (77)
holds with C independent of ¥, and &, whenever ¢ < k.

Proof. By breaking the support of f into a finite number of dyadic cubes, we may assume that f is
supported in q(a, ve) for a small constant v > 0 satisfying v2d? € [27>,27#). This only increases the
. . ro. . _ 17d

bound by a constant multiple. Since f is supported in q(a, ve) and a = (@, aq) € 51, from (72) and the
fact that % <n<1,itis clear that ¢(n(D, t)(Dg—v (D', t))/8)f = 0 for ¢ contained in an interval [c, B]
of length < ve because ¢(n(§, (T —y(L, t))/8) is supported in an O(§)-neighborhood of 7 = ¥ (¢, ¢).

Leta=ty<t; <---<t;=p,1<0(e"), be such that t5, | — t; <v?&2 Since § < 1072¢2, by
(71) and (72) it follows that if 7 € [tg, tx41], then ¢(n(§.1)(t — W ({.1))/8) f(§) is supported in the
parallelepiped

Pr =1 0): max _[¢; —aj| <ve, [t =y (@, 1) = Vey (@' ) (¢ —a')| < 2d%v%?).
1

i=1,....d—

This follows from Taylor’s theorem since ¥ € &(go, N). By (72) it is easy to see that {Pk}fczl are
overlapping boundedly. In fact, ¢ (n(§,)(t — ¥/ (£, 1))/8) £ (§), t € [tk, tx+1]. is supported in

Pr=1teqace):|t—y(@u)| <Ce®, k=0,...1—1,

with C > 3d2v2¢2 and the {P}} are boundedly overlapping because of (72), and by Taylor’s expansion
it is easy to see that P, C Py because the second remainder is uniformly O(g2) for ¥ € & (g0, N).

Let ¢ be a smooth function supported in 27 4 and ¢ =1 on I9 Let Lp, be the affine map which
bijectively maps Py to [ 4 and set ¢p, = @(Lp, -) so that ¢p, vanishes outside of 2P, and equals 1
on Py. Here 2P;, denotes the parallelepiped which is given by dilating Py, twice from the center of Py.
Then we have

— / 2
s/ =3 [ ¢(”(D P =V ’l”)gopk(mf(x) d.
k k
Since p > 2, by Holder’s inequality it follows that
11 D.t)Y(Dg—v(D’, p %
Saf(x)§C8p_2(Z (p(ﬂ( ( al5 v ( t)))(ppk(D)f(X) o )) .
k t Uk
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Hence it is sufficient to show that

l ¢(U(th)(Dd —y (D' 1))

)
1
because (Y ¢ lop, (D) f115)? < C| fllp for 2 < p < co. This follows by interpolation between the
estimates for p = 2 and p = oo. The first is an easy consequence of Plancherel’s theorem because the
{2P;} are boundedly overlapping and the latter is clear since F ! (pp,) € L' uniformly.
Now we make the change of variables

t =20y )+, E— LE) = (L), La(§)).

< CeBpy(c728)lop (D) flIp (78)
4

)m(D)f

L2(Ix)

where
L'§) = ety E+d. La€) =T +y(d. i) +6Vey (@, )My,
and
£xg = xd. eH ) (6 xg Ve (@ 1) = .

Then, (78) follows if we show
n(L(D),1)(Dg — ¥, (D', 1))
(=)

=7 < CBye )| f Iy

p

L7(0,2v2)
when the support f is contained in L™ (2P ). Clearly, n(L(£),t) € £(N) and L~!(2Py) is contained

in the set {(¢,7) : |¢| < 4v, |t| < 8d%v?} C %Id. From Lemma 3.1 there exists ¥ > 0 such that w;tk €
B (g0, N) if 0 < & < k. Hence, using the definition of B, (8) we get the desired inequality for e <«. O

3C. Multi(sub)linear square-function estimates. Let € & (o, N) and set
I =T'W):={(v&n): ez (79)
As before we denote by I' (§) the §-neighborhood I'! + O(8). Clearly, from (72) it follows that, for § > 0,
r'e)ynr*@) =o if|jt—s/>C§ (80)
for some C > 0. We also denote by N’ the (upward) normal map from the surface I'? to sd-1,

Definition 3.5 (normal vector field n = n(y)). The map (¢, 1) — (¢, ¥ (¢, 1)) is clearly one-to-one and
we may assume that the image of this map contains / d by extending v (¢, ¢) to a larger set [ a1y 1,
while (71) is satisfied. Hence, for each & = (¢, 7) € I there is a unique ¢ such that & = (¢, ¥ (Z, 1)). Then
we define n(£) to be the normal vector to I' at &, which forms a vector field on 7¢.

A natural attempt for the multilinear generalization of Sg is to consider ]_[f;l Ss fi under a transversality
condition between supp f;. But, the induction-on-scale argument does not work well with this naive gener-
alization and it doesn’t seem easy to obtain the sharp multilinear square-function estimates directly. We get
around this difficulty by considering a vector-valued extension in which we discard the exact structure of the
operator Sg. Asis clearly seen in its proof, the estimate in Proposition 3.6 is not limited to the surfaces given
by ¥ € B(go, N) but it holds for a more general class of surfaces as long as the transversality is satisfied.
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Proposition 3.6. Let 2 < k < d be an integer and 0 < o < 1, and let T'? be given by ¥ € &(go, N), and
the functions Gi, 1 <i <k, be defined on RY x I. Suppose that, for eacht € I, G1(-,t),...,Gr(-,1)
satisfy that, for 0 <§ K o,

supp Gi(-,1) C T (@), tel, (81)
and suppose that

VOI("(SIL n(SZ)’ s ’n(%—k)) 2 0, (82)

whenever &; € supp G,( ,t) + O(8) for somet € I. Then, if p > 2k/(k — 1) and g > 0 is small enough,
for e > 0 there is an N = N(¢) such that

k
[T1GiNL2¢y

i=1

holds with C, Cg independent of .

k
o 1
<Co~Ces 81_[(52||Gi||L2t) (83)
LP/k(B(x,8-1)) i=1 "

Without being concerned about the optimal o for a while, we first observe that, for p > 2, there is an
o such that

1Gill 2l Lo ay = C5NGill 2, (84)

holds uniformly if ¥ € &(go, N) and N is large enough (N > 100d). (It is enough to keep ||/ lew 4y
uniformly bounded.) To see this, let ¢ be a smooth function supported in 2/ with ¢ =1 on I, and we set
Kf = F Y o((r —¥(£.1))/C8) ¥(§)). Then, by Lemma 2.9 |K}(x)| < C8Rp(x) for a large M with
C depending only on ||{/||¢c~ (7). Since supp F(Gi(-,1)) C I'’(8), we have G;(-.,1) = Kg *Gi(-,1).
So, |Gi(x,1)| < C88p *x|Gi(-,1)|, t € I, and by Minkowski’s inequality we get

1Gi(x, I)HL%(]) <Céfpy * (”Gi("[)”L%(]))(x)- (85)
Young’s convolution inequality gives (84), namely with @ = d — 1, if taking sufficiently large M.

Proof of Proposition 3.6. Since

=y (1)

FG ) =0

))?(S)f(Gi(-,t)),

by Schwarz’s inequality and Plancherel’s theorem, |G; (x,t)| < §2 |Gi(-,1t)||2. So, this gives (83) for
p = oo. Thus, by interpolation it is sufficient to show (83) with p = 2k/(k —1).

Let us set R = §~! and we may set x = 0. Following the same argument as in the proof of
Proposition 2.11 we start with the assumption that, for 0 < § < o,

k
[T1GilL2¢y

i=1

k
_k
SRR []IGil,2, (86)
L2/=1(B(0,R)) i=1 x'

holds uniformly for ¥ € &(g,, N) whenever (81) and (82) are satisfied. By (84) and Holder’s inequality,
this is true for a large @ > 0. Hence, it is sufficient to show (86) implies that for ¢ > 0 there is an N = N(¢)
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such that, for some « > 0,

k
[T1GilL2¢ry

i=1

k
< Co ™ REFCRTITT G2 (87)
L2/®=D(B(0,R)) =1 o

holds uniformly for ¥ € &(go, N). Then, iterating this implication from (86) to (87) gives the desired
inequality; see the paragraph below (20).

Since ,oB( VR is supported in a ball of radius ~ R~ 2, the Fourier transform of p B(z.vVR) Gi(-,1)
is contained in T' + O(R™ 2) for each ¢ and (82) holds with § = R™ 2 since § <« 0. Hence, by the
assumption (86), it follows that

k
a k
Gill;2 <CRZR 4| |lp Gill;2 . (88)
i ,ﬁ) LT () Lz/(k_l)(B(Z,«/E)) l:l_ll B(ZA/E) ! Lx.t
We now decompose G; (-, ) into {G; 4 (-, 1)}, which is defined by
F(Gig(-.1) = xqF(Gi(-,1)). (89)

Here {q} are the dyadic cubes of side length /, Rz < < 2R_%, which we already used in the proof of
Proposition 2.11. We write

Gi(x.1) =Y Gig(x.1).
q

In what follows we assume G; 4 # 0. By (81) it follows that, for each ¢, the cubes {g} appearing in the
sum are contained in I'? (R_%) because G; 4(-,t) = 0, otherwise. We also note from (72) that there is an
interval /; 4 of length C R™2 such that Gig(-,1)=0ift € 1; 4. Hence we may multiply the characteristic
function of yy, , so that

Gi,q :Gl',q("t)XIi.q(t)' (90)

Since the Fourier supports of {p B(z.vER) Gi ¢ (-,t)} are boundedly overlapping, by Plancherel’s theorem
it follows that

H lPpe vy Gillz2, =€ H 1)

i=1 i=1

1
(Z 195(s. /7, Gl )

2
L.x,l

Combining this with (88) we have

k
<CRERT]
i=1

VUil

1
2
(Z |PB(z,~/§)Gia‘1|2)
q

Since p B(z.VR) is rapidly decaying outside of B(z, v/R), we have for any large M > 0

L2/Gk=1) 12

X.t

i=1

k
[T1ese,vm Gillza

i=1

1,2/G—1)

k
< RS% 1_[

i=1

1
2
2 -M
XB(z,R1/2+6>(§q:|Gi,q|) ‘LZ +R ||||Gz 2, (92

x.t i=1
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We now partition the interval /; 4 further into intervals I =[t;,t141], L =1,... 4o, of length ~ R™1L,
Then the Fourier support of G; 4(-,1), t € I = [y, tl+1] is contained in an O(R™') neighborhood
of ', Let (¢g, 74) be the center of ¢ and we deﬁne a set r by

={C D L=l <C82. |t =Yg 1)~ VeU(Lq 1) - (§ —Cg)| < C8) (93)

with a constant C > 0 large enough. It follows that the Fourier transform of G; 4(-.?), t € 1! igr 1

supported in r ThlS is easy to see from the second-order Taylor approximation because ¥ € &(go, N ).
Also deﬁne m by

m! :p(§—§q 77_W(quI)_VZW(gq»tl)‘@_{q)) o)
1,94 ’
CV§ C$
with a suitable C > 0 such that mll., 7 is comparable to 1 on r . Now, we set
F(Gig(.0) = (m,’-,quf(Gi,q(- gy, (. 95)

Denoting by nll. 4 the normal vector n(Cq, ¥ (Cq.11)), we also set with a large C > 0

—1
Tl-l,q:{x:|x-nf’q|§C, |x—(x-nf,q)nf,q|§CR 24

Let us set Kl.lq = ]-'_l(qu) so that G 4(-,1) = Gl.lq(-,t) * Kl.lq ifr Il.lq. Since p is supported
in q(0, 1),

_d+1

< 2 XRTil’q'

|Kiql SR
By (90) it follows that

X 2 _ X 2 _ X 2
2_NGialTzy = 2 1Giallzzg, = 2 1Gialz2
q q q.l
Thus, by (95) we have
Do NGial oy =D NGig G0 Kigliar
q q.!
SYNGHCDlTa g * 1K ]
q.l "

S NGig oDl o+ (R F e (96)
q.!

We denote by T; T} 4 the tube R TE T; l , which is an R!*¢-times dilation of T, l from its center. So,
from (96) we have, for X,y € B(z, R2+8)

AT,
Z”Gi,q(yv')”Lz(]) RCEZ”G q( t)”LZ(Il ( T.l'q)(X).
q | i’ql
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Once we have this equality we can repeat the argument from (23) to (26) which is in the proof of
Proposition 2.11 and also using (92), we have

k
[T1Gi .20y

i=1

L2/(=D(B(0,R))
S R08+%+7dzk +g’
L2/%—=1(B(0,2R))

H(Zuc GO ) (X l|));

i=1 |

where £ = R™M ]_[{-;1 1Gill;2 . for any large M > 0. Hence, for (87) it suffices to show that

,_Hl(Z”G aC 0o (|X f|));

Since by (95) |G} ez pla~ NGiallzar,
supports of F(G; q( 1)), and by Plancherel’s theorem

> liGi, 2t ) 5~ 1Gig 122y = [1Gill 21y |5
q

k
d+k

<o K ReeR—H 1_[ 1G> .

L2/(k=D(B(0,2R)) im1 o

,» making use of the disjointness of Il-l 7 and the

Hence, the above inequality follows from

(i)
i.q
',ql
LetZ; ={(¢q,]): G,Zq # 0}, I; CZ; and 7;1‘1 be a finite subset of R?. By scaling and pigeonholing,
losing (log R)€ in its bound, this reduces to

_ _m
<Co ™ R“R 1‘[Z||f,-€,,||1.

i=1 g,

o1 g1 L1/:=D(B(0,2R))

< Co R¢R“F" ]_[ YooY T+ O

= 1
i=1(q,)ez; ‘1767;"1

+T
: 7 1/(k=1)
= R L (B(0,2))
i=1(q.D€Z; zeT!,

Here we note that if G; 4 # 0, then g € supp F(G;(-,1)) + O(+/8) for some . So, by (82) we have
Vol(ny,...,n;) = o whenever n; € {nf g Gl.lq #0}, i =1,...,k. Therefore, the estimate follows from
the multilinear Kakeya estimate which is stated below in Theorem 3.7. O

Theorem 3.7 [Bennett et al. 2006; Guth 2010; Carbery and Valdimarsson 2013]. Let2 <k <d, 1 € R
and %, i =1,2,...,k, be collections of tubes of width R™2 (possibly with infinite length), with major

axes parallel to the vectors in ©; C S21. Suppose Vol(01, 65, ...,6;) = o holds whenever 6; € ©;,
i =1,..., k. Then there is a constant C such that, for any subset T; C%;, i =1,...,k,
k k
]_[(Z XT) <CR"5"<;—11_[(Z |Tl-|).
i=1 \T;eT; L1/E=D(B(0,1)) i=1\T;eT;

This is a rescaled version of the estimate due to Guth [2010] (the case d = k) and Carbery and
Valdimarsson [2013]; also see [Bennett et al. 2006]. However, we don’t need the endpoint estimate for
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our purpose and the estimate in [Bennett et al. 2006] is actually enough because we allow a §7¢ loss in
our estimate.

Corollary 3.8. Let € &(so,N), n € E(N), and 0 < § < 0. Suppose that (82) holds whenever
Eesupp fi +0(5), i =1,2,...,k. Then, if p>2k/(k—1) and &5 is small enough, for & > 0, there
isan N = N(¢e) such that the following estimate holds with C, Cg, independent of ¥ and n:

k
<Co %5 [ TG fil2).

LP/k(B(x,6—1) i=1

k
[Ssw.nf

i=1

To show this we need only to replace G; with ¢ (n(D, t)(Dg—y (D, t))/8) fi and apply Proposition 3.6.
The assumptions in Proposition 3.6 are satisfied with Gy, ..., Gg. Thus, the estimate is straightforward
because || ¢(n(D.1)(Dg —v(D',1))/8) f; ”L)% s 82| £ ||2, which follows by Plancherel’s theorem and
taking ¢-integration first.

The following result is a consequence of Corollary 3.8 and localization argument in the proof of
Proposition 2.10.

Proposition 3.9. Let 0 <§ € 0 < 6 < land ¥ € &(eo, N), n € E(N) and let Q1,..., Q) C 319 be
dyadic cubes of side length &. Suppose that (82) is satisfied whenever & € Q;, i = 1,...,k, and suppose
that supp f,' CQi,i=1,....k. Then,if p>2k/(k—1)and & is small enough, for & > 0 there is an
N = N(¢e) such that

k
d_d=2
<Co S5 T]G"“Z 1 fill) 98)

i=1

1_[ Ss (¥, 77)fz
i=1
holds with C, Cg, independent of W and 1.

Proof. The proof is similar to that of Proposition 2.10. So, we shall be brief. Let ¢, Qi, %i, {B}, and {B}
be the same as in the proof of Proposition 2.10. We set

Kll‘ =]_——1(¢(n(g’[)(TS_W(;I))))?Z(E))

Then S5 (. n) fi = ||IK! * fi ||L2(I)- The (p/ k)-th power of the left-hand side of (98) is bounded by

Z[]‘[nK’*fanz(,) XST411,

i=1

where
I—Z/HMK’*(;(Bﬁ)uLz(,) x, 11=Z( ) /1‘[||K’*gl||L2(,) )
i=1 B “gi=xge fi i=1
for some i

As before, the second sum is taken over all choices with g; = xp.fi or xz fi, and g; = yge fi for some i.
By choosing ¢ > 0 small enough, we see that y1(D)(x5.f1), - .., Xk (D)(xz.fk) satisfy the assumption
of Corollary 3.8. Since K! * (x5/£i)) = ¢(n(D.t)(Dg — ¥ (D', 1))/8) %i(D)(x5 /i), by Corollary 3.8
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and Holder’s inequality
—c.{1\¢ kﬁ £ _Clcé‘kz_u 3
150 (3) STt isnd <07 (3)" (TT8% % 1)
B i=1 i=1
To handle /7 we note from Lemma 2.9 that | K! (x)| < C8Rp (x) with C depending only on ||y lewn ra—1y,
Inllc~ (zay- Thus,

IKT * Grge ) ()2 < C5* M40 Ry y x| fi] (%)

if x € B, and || K; % fl-(x)llL%(I) < C38Rg+1 *|fi|(x). The rest of proof is the same as before. We omit
the details. O

3D. Multilinear square-function estimate with confined direction sets. From the point of view of
Proposition 2.11 we may expect a better estimate thanks to the smallness of supports of the Fourier
transforms of the input functions when they are confined in a small neighborhood of a k-dimensional
submanifold. The following is a vector-valued generalization of Proposition 2.11.

Proposition 3.10. Letk,2 <k <d, be an integer, 0 <o < 1 be fixed, and I1 C RY be a k-plane containing
the origin. Let Y € &(co, N) and T be defined by (19). For 0 < § < o, suppose that the functions
G1....,Gy defined on R? x I satisfy (81) for t € I and (82) whenever &; € supp F(G;(-.,1)) + O(5),
i=1,2,....k, forsomet € 1. Additionally we assume that, forallt € I,

n(supp G1(-.,1)),....n(supp Gr(-.1)) C sS4 N (I + 0(8)). (99)
Then, if 2 < p <2k/(k —1) and &g is sufficiently small, for ¢ > 0 there is an N = N(¢) such that
k Lo k
[T1Gi2 <o G5 G TT G112 (100)
i=1 ek (B s—1) i=1 !

holds uniformly for ¥ € (go, N).
The following is an easy consequence of (100).

Corollary 3.11. Let {q}, q C %Id, be the collection of dyadic cubes of side length I, § <1 < 2.
Define G q by F(Giq4(-,1)) = xqF(Gi(-.1)) and set R = % Suppose that the same assumptions as in
Proposition 3.10 are satisfied. Then, if 2 < p <2k /(k —1) and &, is small enough, for ¢ > O there is an
N = N(¢e) such that

k

l_[ ||Gi ”L%(I)
i=1
holds uniformly for ¥ € (g0, N).
Proof. Observe that

k

<o G5

Lp/k(B(xaR)) i=1

(101)

1
2
(Z ||G,-,q||ig(,)) o8GR
q

p

<|T1(2)e

k
1_[ ||Gi ”L%(I)
i=1

Lr/k(B(x,R)) LD | pork
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Then, the functions p((- —x)/R)G;, i = ., k, satisfy the assumption in Proposition 3.10 because
supp F(p((- —x)/R)Gi(-.t)) = supp G( t) + O(R™1). So, from Proposition 3.10 we get

[ (& )o
i=1

Since G; = Zq Gi,q and the supports of {]—"(p((- —x)/R)Gij q(-, z))}q are boundedly overlapping, by
Plancherel’s theorem it follows that

k
—C. —d(4-1
|Gi||L%(1) <o RSHR (G-3) L

Lr/k(B(x,R)) L%(I).

X 2\
20 o = (Sl )
Combining this with the above inequality, we get
u o—Ce R¢ —-d(1-1)
izl_[1“Gi”L%(1) Lp/k(B(x,R)) : HR S ‘ ( )|(Z ”G’q”Lz(”) Hz
Now Holder’s inequality gives the desired estimate (101). O

As an application of Corollary 3.11 we obtain the following.

Corollary 3.12. Let € &(¢o, N), € E(N), 0<8 K & < 0, and Ss = Ss(V, n) be defined by (74).
Let T1 be a k-plane which contains the origin. Suppose (82) holds whenever &; € supp f,' + 0(5),
i=1,2,....k, and

n(supp /i) CII+ O@), i=12,... k. (102)

Let {q}, q € %Id, be the collection of dyadic cubes of side length |, ¢ <1 < 26. Define f;q by

F(fi,g) = xqF(fi). Then, if 2k/(k —1) < p <2 and &, is sufficiently small, for € > 0 there is an
N = N(¢) such that

k
[]5s

i=1

holds uniformly for ¥ and .

<o ]

Lp/k(B(x,l/ﬁ)) i=1

(Zlszz,ql ) PR/ |

This follows from Corollary 3.11. Indeed, it suffices to check that
Gi =p(G(- —x))p((Dg —¥(D'.1))/0) f;

satisfies the assumption of Corollary 3.11 with § = G as long as 0 < &. This is clear because

=74 (¢ n(3)) (650 ).

Proof of Proposition 3.10. The argument here is similar to the proof of Proposition 3.6. The estimate for
p = 2 follows from Holder’s inequality and Plancherel’s theorem. So, by interpolation it is sufficient to
show (100) for p =2k /(k —1).
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Letusset R = % > 1 and we may set x = 0. As usual we start with the assumption that, for 0 < § < o,

k
< CRUR™% []1Gill2 (103)
LP/K(B(0,R)) i=1 .

k
1_[ ||Gi “L%(I)

i=1

holds uniformly for ¥ € &(go, N) whenever G1, ..., Gy satisfy (81), (82) and (99). By (84) and Holder’s
inequality, (103) is true for some large . As before it is sufficient to show that (103) implies for any
& > 0 there is an N = N(¢) such that

k
[T1Gi 20y

i=1

k
< CoRETR7E TTIIGi2
LP/k(B(0,R)) i1 H

holds uniformly for ¥ € &(so, N). Then iteration of this implication gives the desired estimate (100).
Fix z € R4 and consider PB(. f)Gl( ), - Pp(, f)Gk( ,1). Then it is clear from (81) and (99)
that supp]:(pB(Z f)G,( 1) CT+ O(R™ 2) and
_1
n(supp F(pg; /0, Gi(-.1) C TL+ O(R™).
Also, since § < o, (82) holds if & € supp ]—"(pB(z YR) G;(-,t)). Hence, by the assumption (103) we get
[T1ese.vrGill2a

i=1

k
a _d
SRERTT [ [ lppe,yr)Gillzz - (104)
i=1

L2/(k—1)

Now we proceed in the same way as in the proof of Proposition 3.6, and we keep using the same
notations. As before, let {g} be the collection of dyadic cubes (hence essentially disjoint) of side
length ~ R™2 such that 7¢ = U ¢. We decompose the function G; (-, ) into G; 4 (-, ), which is defined
by (89), and get (91), which is clear. Then, combining (91) and (104), we have
k

1
o _d 2 2
[TesevmGilzay| - <CRERT]] (Z'PB(z,ﬁ)G’?q') ‘ )
i=1 L i=1"\ ¢ Ly
Then this gives
k Lk 3
Gi <R>% . Gigl? +¢, 105
l_[ ||PB(Z,¢§) l”L?(I) L2/ l_[ XB(z,R!/2+ )(Xq” il ) L2 (105)

i=1 i=1

x.t

where £ = R™M ]_[l_l |Gi ||L2 for any large M.

We also denote by (N?)~! (deﬁned from N (1971 to 19~ 1) the inverse of N* : ' — S9~1 which is
well defined because ¥ € B(go, N). Since 3, € (1 —¢&o, 1 +&5), there is an interval I; ,¢ of length CR™:
such that G; 4(-,t) = 0if t € I; 4; see (90). As in the proof of Proposition 3.6 we partition /; 4 into
intervals Ii . L =1, tix1l, L =1,..., 1o, of side length ~ R™1. Since the Fourier transform of G; (-, 1)
is supported in" +0(@8)ift € I l = [t;,t;+1] and the normal vectors are confined in IT + O(§), it
follows that

supp F(Gi g (-, 1)) CTH(E) N ((N)™HI) + 08)), 1 € [t 1141].
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Fix #;, and let us set

E'g = Glgo ') € (ND)THIT) N TH) N (supp F(Gig (- 11)) + O(8)).

(As before, we may assume that this set is nonempty, otherwise the associated function Gl-l 7 is equal
to 0. See below.) Let vy, ..., vg—1 be an orthonormal basis for the tangent space T, ((N"7)~1(1T)) at
El g anduy, ... ug_ be aset of orthonormal vectors such that (N (St’ Yo ULy ooy Vs ULy e U g}
forms an orthonormal basis for R4, Let us set

Pl = (e ) NN ) < C8, [(E—E") v <CVE. i=1..... k-1,
and [(§—§/)-wi| <C8, i=1,....d -k},

Pl ={e:|-NI(E )| <C. |E-v|<CVE i=1... k-1 and|§-u|<C.i=1.....d—k}
with a sufficiently large C > 0. Then F(G; 4(-,1)), t € [t;, ;1] is supported in r g

The rest of proof is s1mllar to that of Proposmon 3. 6 so we shall be brief. Let m i.q be a smooth
function naturally adapted to ri 7 such that ml. P 1 on r and F~ l(m” ) is supported in R P; ’ . This
can be done by using p and composing it with an approprlate affine map; for example, see (94). As before
we define G! (-, 1) by (95) and let K}/, = F~'(m{ ) so that G! (-,1) =G} (-.0)x K] iftell .
Hence,

ZG,-,qzzc; Qo OxK! K SIRP T Xrpl,

Let us set P” = R1+£ Pt’ Hence, from the same lines of inequalities as in (96) and repeating an
argument 51m11ar to that in the proof of Proposmon 3.6 we have, for x € B(y, R2 +€)

Ap

0 (Z 1Gral 2(1)(x)) <RIl O * (| P |)(y>
i=1 i=1gq,i

Now, we use the lines of argument from (23) to (26), and combine this with (105) to get

k
1_[ ||Gi “L%(I)

i=1

L2/®k=D(B(0,R))
< Rcs-l—% +E.
L2/&=1(B(0,2R))

H(ZHG WO, (ﬁf&)

i=1

. ~ 2 . .
Since )", ;| 1Giq Iz2(12y 15~ 2, 1Giq Iz2(r,) Hz ~ ||G; ”Lf(,,’ the proof is completed if we show

H(qu . ) <CR”80—1R—dﬁ(Z ||f,,,l||1).

i=1 L2/6=D(B(0,2R)) i=1\q1

Finally, to show the above inequality we may repeat the argument in the last part in the proof of
Proposition 2.11. In fact, we need only to show the associated Kakeya estimate; for example, see (28)
and (97). Using the coordinates (1, v) x IT x IT+ = R4 as before, it is sufficient to show that the longer
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sides of Pl.l’ 4 Are transverse to IT1. More precisely, if €, is sufficiently small and N is large enough, there
exists a constant ¢ > 0, independent of ¥ € &(go, N), such that, for

w e (T, (N7H(I) @ span{N(E/,)}) (106)

(29) holds. Since ¥ (¢, t) = %|§|2 +1+R with [R|l¢w (raxr) < €0, by the same perturbation argument
it is sufficient to consider ¥ (¢, ¢) = %|§ |2 + ¢. For this case (29) clearly holds for w satisfying (106)
because translation by ¢ doesn’t have any effect. The same argument works without modification. [

3E. Multiscale decomposition for Sg f. In this section we obtain a multiscale decomposition for
the square function, which is to be combined with multilinear square-function estimates to prove
Proposition 3.2. This will be carried out in a way similar to how we obtained the decomposition
in Section 2, though we need to take care of the additional 7-average.

Let0<eo <1, 1 KN, ¥ € (o, N), n€E(N), and S be given by (74). Let N*, n be given by
Definition 3.5. Let ¥ = k (g0, N) be the number given in Proposition 3.4 so that (77) holds whenever
O<e<k, Ye Q_i(so, N),and n € E(N). As before, let o1, ...,0m, and My, ..., My, be dyadic numbers

such that
0 K041 K- Kop Lmin(k, 1), M; = Ul (107)

1

We assume that f is Fourier supported in %I 4 We keep using the same notation as in Section 2E. In
particular, {q’}, {2’} are the collection of (closed) dyadic intervals of side length 20;, 2M;, respectively,
so that (37) and (40) holds.

3E1. Decomposition by normal vector sets. Let {#'} be a discrete subset of S9~1 whose elements are
separated by distance ~ o;. Let 9’ be disjoint subsets of {q’} which satisfies, for some 67,

o' c{q’ : dist(n(q’),0") < Co;} (108)

and

o' =t} i=1....m. (109)
of

Obviously, such a partitioning of {q’} is possible. Disjointness between ?’ will be useful later for
decomposing the square function. Then we also define an auxiliary operator by

1
1
o f = (XL I1sssul)
qi €vi
As before, 0/, ka, D}, and O;* denote the elements in {bi } for the rest of this section.
Definition 3.13. We define n(d") to be a vector! 6 € {#?} such that dist(n(q’), #) < Co; whenever q' € d'.
Particularly, we may set n(d') = 6/ if (108) holds.

TPossibly, there is more than one 6. In that case we simply choose one of them. Ambiguity of the definition does not cause
any problem in what follows.
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Since the map N’ is injective for each ¢, the elements of 9’ are contained in an O(o;) neighborhood
of the curve {£ : n(£) = 6’} with #” = n(d"). From (72) we observe that for any interval J of length
o; there are as many as O(1) q' €9’ such that ¢((Dd —y (D', Z))/S)fqi #£ 0 if t € J. Hence, dividing
I intervals of length ~ o; and taking integration in ¢ we see that

1

Sg( > qu) < (Z |ngqf|2)2 =6, f (110)

qi el qi =

with the implicit constant independent of ?'. Since S5 f < Y oi Ss (Zqiebi fqi), i=1,...,m, we also
have

1
2
szsZ(Z |S(sfqi|2) =) 6, (111)
o “gledl of
3E2. o1-scale decomposition. Decomposition at this stage is similar to that of Ty in Section 2. So, we
shall be brief. Fix x € R? and let 91 € {0'} such that
G, f(x)=max &, f(x).
[ ol 0

Considering the cases ) i S, f(x) = 1004 601 S(x)and ) S, f(x)> IOOdGal f(x) separately,
we have i i
_ 1
S5/ S Y6, /) S8, f@ +ol ™ max (8, ()8, f(x)
o! n@Y)-n@Y)zo)
<6, [0l max (S, /()6 f(x)?.
* L3l 1 2

1 Dl ’ 21
|n(@)—n(2,)IZ01

Since #0' < o071 and GleGOlf ( dleal, qzeal(S5f1S3f 1)?)2,

S5 S S0l é(meq ) top ( ) (Saflsz))

qleal o1}
In(@})—n(03)|z01

N\'—‘

N =

Taking the L? norm on both side of the inequality yields

N =

1S5/ 1p Sof 5(Z||ngq ||,,) rorc( X isssysisyl})

q},q% trans
Hence, using Proposition 3.4 and Lemma 2.6, we have
2 1
» -2 —-C 2
1S5 fllp < 0y Bp(oy “8) || fllp+o1 "~ max [[Ssfo1Ssfullp- (112)
q% q% trans h 277

We proceed to decompose those terms appearing in the bilinear expression.
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3E3. oy-scale decomposition, k > 2. Fixing o, for | € 0~17%, let A; and 7; be given by (32). The
following is a slight modification of Lemma 2.13.

. 1
Lemma 3.14. Let 0 be a subset of {q'}. Set S, f = (Zqiea |Ss Sy )2, and set
1 1
[Sof1= Y A7Sy(uf), & fll= Y. (AAr)>S,(tatif).
leM;z74 I,l'eM;74
If x, xo € ', the following inequality holds with the implicit constants independent of 0:
S, f(x) T[S, fl(xo) S [S; f1I(x). (113)

Proof. Note that ' is a cube of side length 20;. Since x, xo € ', using (35) and the Cauchy—Schwarz
inequality, we get

_ / 2 _ / 2
o(PE ) e £ X aife(ME PR
leM;74
Integrating in ¢ we get
(Ss.fi (N> S > A(Ss(t fi)(x0))* (114)
leM; 74

Summation in g’ € gives

) 1 }

(Zeye?) = X 4} (Tessaspon?)

qi €d leM; 74 qiev

from which we get the first inequality of (113). By interchanging the roles of x and x¢ in (114) and
summation in g’ € 9, it follows that

D Ss@fi)@o)?S D Ap Y (S5 (taary f) (X)),

qi €d leM;74 qi €d
Putting this in the right-hand side of the above inequality and repeating the same argument, we get the
second inequality of (113). O

Now we have the bilinear decomposition (112) on which we build a higher degree of multilinear
decomposition.

3E4. From k-transversal to (k+1)-transversal, 2 < k <m. Let us be given cubes q’f‘l, qg_l, cee, q’,i‘

1
of side length o _; which satisfy (55). Though we use the same notation as in the multiplier-estimate
case, it should be noted that the normal vector field n is defined on / -1y CJ (see Definition 3.5). As
before, we denote by {q{‘} the collection of dyadic cubes of side length o contained in qf.‘_l, see (56),

which are partitioned into the subsets of {Df.‘} so that

U( U qf‘)zqﬁ“l, i=1... ..k

k k k
' ok gk et
So, we can write
k k

1_[ Ss( > fq;c—l) =[] Ss (Z > fqg.c)

=1 e =1 Vo et
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and recall the definition 1
GakaC 1= Z |S(qu§<|2)j
a; €0
Fix QF and let x¢ be the center of Q. Let bf.‘* € {Of.C } be an angular partition such that
Ga{.‘* fq{_(—l(xo) = IIDI?k.X GD{F qug—l(xo).

Let us set
Af ={of :[6 ; fu—1](x0) > (0%)*! max [& , fu-1](x0)}. 1=ic<k. (115)
% 74 1<j<k 0579
We split the sum to get
k k k
Mss(C X ) <Ms( X T a)r X TI8(X #) aw
i=1 of qfedf i=1 of eAf qf evf @ ,... 00T AF =1 ay €vf
Thus, if x € QF, by (113) and (110) the second term in the right-hand side is bounded by
k k
STl Sg( ) qu) CETED DR § (A [
(Dk>aD]]§)¢nf€=l Z\;( i=1 q{CEDfC (Dkaaal]::)gl_[f’:l K{{ i=1
k
< ((max [6 fyx1](x0))

1<j<
S (max 16y f1(x0))" 5 (max|[Sy /11()" (117)

Here {0%} = Ui<i< k{bk } and the third inequality follows from the definition of &« f because ql - qf‘ L

Since (117) holds for each 0¥, integrating over all 0k, using Lemma 3.14, Proposmon 3.4 and Lemma 2.6,
we get

Z ﬁSS(Z qu‘)

kK xk i= Kk
@F .00 eTi=, A =1 q; €

‘;z < I 18 A1, = supma S (),

< sgp(z e (rhf)n;;)"
(5-4)
< supoy Z IS5t S 17

q;
2
S0 Bp(oi 28| f llp- (118)

The second-to-last inequality follows from the definition of G« f and Holder’s inequality since there are

N =

as many as O(og 1) g% c ok,

We note that vectors ”(0 ) - n(ak ) are linearly independent because q’f_l, qlzc_l, e, q]]i_l are
transversal. We also denote by Hk Hk(qk Lo Cll/i_l, 0K) the k-plane spanned by the vectors
”(01*)7 ey n(Dk*). Let us set

M= ... gk k) = pF : distr(@%), TTX) < Coy ).
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We split the sum and use the triangle inequality so that

(X X a)<lls( X S r)r X [s(Xw) oo

=1 “ofehk gfedt of eAf qf e} ofedf 1=l ey
D{-‘ en Df‘ &M for some i
For the k-tuples (9%, ... ,Ollg) appearing in the second summation of the right-hand side, there is a Df.‘ for

which n(bf.‘) is not contained in ITX + O (o). In particular, suppose that n(le) ¢ TIK 4+ O(oy). Then, by
(113) and (115) we have
k

1_[ SS( Z fk) ()% 1_[[ of Jo=11(x0) = Uk_c([Ga’f fq’f_l](xo))ﬁ n([Gaf;‘* fq{-‘—l](xo))ﬁ

i=1 keak i=1 i=1

Recall that Vol(n(&1),n(&2),...,n(¢;)) Z 01 ---0p—1 it & € qf.‘_l, i =1,...,k. From the definition
of M it follows that dist(r(q~), Hﬂf) > oy if ¥ € oF and n(o%) ¢ M. Hence

Vol(n(£1).n(£2). ... n(5). n(Ekq1)) 2 01 -+ 0

if § € qf.c and ql edk . i=1,...,k, and Ert1 € q’,i_H and qll§+1 € DII‘. So these cubes are transversal.

1%

Since there are only O(0; € ox-scale cubes, by (113) and Holder’s inequality

ﬁ Sa( > fq;c)(x)

i=1 g eok
! k
k.
S0 (16 5 Sy JIE) T TS 6 S lleo) 75
i%* i
i=1
k+1 k+1 2ok
—C -~ =
< 0k > I1 Al,-Al;( > (1_[ Ss (T, +11) Sk )(x)) ) :
l],li ..... lk+1,l;<+1€MkZd i=1 qllc""’qz-‘rl trans i=1
Here Al A, 1/ are rapidly decaying sequences. The same is true for any ok, . Ok satisfying Of-‘ € Kf.‘ ,

1<i<k, and Dk ¢ N for some i and this holds regardless of QK. So, we have for any x,

S (X s)oo
kerk i=1 ¥ edk
D{-" &M for some i

k+1 k+1 1’1 %
S . HAziAI;( Z (H S (v, +1) Sk )(x)) ) . (120)
llalia'")lk—‘rlal]/(_lrl i=1 q]f, ,q]\_~_1 trans =1

Since gli A, 1y are rapidly decaying, taking the L% norm and a simple manipulation give

k
LT IIs(E )
aj‘ eAr i=1 af edk
Df—‘ &N for some i

k+1 2
1_[ S (ti fo)
T

=1

< Gk_c sup max
% Tl geees Tk+1 ql 5. ’qk—i-l trans

(121)
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We now combine the inequalities (116), (117), (119), (120) to get

ﬁSS(Z Z qu—‘)

i=1 ok gk eok
< (ma 1650 /110)* + 7ot i Ss( DS fqlk)
i=1 KeAk qFedk
a"em
k+1 k+1 2o\ k
D S || Az,-AI;( ) (1‘[ S 11 fot )(x)) ) .
llalia"'alk+lﬁl]:f+1 i=1 qllcy ’qk+1 trans =1
Here O depends on q’f‘l, R qi_l,ﬂk. By taking the %—th power, integrating on R4 and using (118)
and (121) we get
k+1
H (1_[ S&( Z qu)) “ < Uk Bp(ak 2O N +O’k sup max 1_[ Ss(Ti fx
i=1 I‘C k 1 TlseesTh+1 q] ..... qk+1trans i=1 :
k 1
p
(s ) o
ok li=1 oke a LP/k(9k)
(G [CTa: L L qu‘ !
where [‘)_T](ql_ ey qk ~1 0K) denotes a subset of ‘ﬁ(qk Lo q],:_l, 0F) which depends on q’f_l, cees
—1 9k,
3ES5. Multiscale decomposition. Fork =2,...,m, let us set
P 1
— D
S)ﬁkfz sup - omax (Z l_[Sg( Z Z f,qu) ) .
Tl Tk A7 seees qy~  trans ak li=1 Df-‘e q’-‘ea’? i Lpr/k(Qk)
[ [CH IR S o L B L el L
Here [‘ﬁ](qk_l, cees qi_l QF) also depends on 1, ..., 7 but this doesn’t affect the overall bound.
Starting from (112) we successively apply (122) to k- scale transversal products (given by qk LI qﬁ 1
transversal). After decomposmon up to the m-th scale we get
1S5 f1lp < Z 07 lok Bp(0; 28| f o + Z o S f
k=1 k=2
m+1
+0,,_1C sup max 1_[ Ssti fq (123)
Tl geees Tm+1 ql 5. ,qm+1trdns i=1 Lp/(m+1)

3F. Proof of Proposition 3.2. We may assume d > 9 since ps > 2(d +2)/d for d <9 and the sharp
bound for p > 2(d 4+ 2)/d is verified in [Lee et al. 2012]. So, we have ps(d) > 2(d —1)/(d —2). The
proof is similar to that of Proposition 2.3. Let 8 > 0 and we aim to show that B (s) < C for 0 <s <1 if
p > ps(d). We choose & > 0 such that (100d) ™! > ¢. Fix s, >0 and N = N(¢) such that Corollaries 3.8,
3.11 and 3.12 hold uniformly for ¥ € &(eo, N).
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- 205244 p 2 B —C -2 _
Let s < 4§ < 1. Obviously, (o, “8) 2 ~»7" B(o;, “8) < BP(s) + 0, ~ because s <0, “§ and B(§) =
B, (8) < C for § 2 1. Hence, it follows that

2 L_i
0f Blop?8) S0y 7 7 PRI (58 ) 4 0. (124)

We first consider the (m+1)-product in (123). By Corollary 3.8 we have, for p > 2(m + 1)/m,

m+1 ﬁ
< Cooy C6T T £ (125)
Lpr/m+1)

sup max
Tl Tkl A7 5oy tanS || -

SsTi fo
=1

For M, as before we have two types of estimates. The first one follows from Corollary 3.8, while the
second one is a consequence of the square-function estimates in Corollary 3.12. From the definition of DK,

we note that q’f, q’z‘, cees qi are contained, respectively, in q1 , q’zc L qﬁ_l, which are transversal.
Hence, we have
k k
s % > oaf)ws ¥ IS
i=1 Dfe[ﬁ](qlf_l,...,qﬁ_l,ﬁk) q; EDk q]f,qlzc,...,qé: trans i =1
gl
Here “q]f, g5 qk trans” means Vol(n(§1),...,n(&;)) > 01 ---0r_1 provided §&; € q{.c, i=1,...,k.

Since there are as many as O (0} © 1) k-tuples (qk Lo, qi_l) and the above holds regardless of QF, by
Corollary 3.12 we have, for p > 2k /(k — 1),

_ _ —Co_d=2,d_

M f <or€ sup Z ]'[Sa(rz ‘ Nokcé = £l (126)

P af a5 ...,qf trans =1
Estimates for MK via Corollary 3.11. By fixing 71, ..., 7, and (qk L q’,ﬁ‘l) satisfying q’l‘_l, ey q’,g_l
are transversal, we first handle the integral over 0k Wthh is in the definition of M*. Fori = 1,...,k, set
e R (X )
W eM(af a7 LK) T gfedf
a) qu‘ !

Since q]f_l, e, qi_l are transversal, (82) holds with 0 = o7 - - - g;_1 whenever &; € supp f,' + O(oy),

i=1,2,...,k. Also note that n(bll‘), ... ,n(b ) C Hk(qk Lo, q’]i_l,Qk). Hence, it follows that (102)
holds with ¢ = oy. Let us set

o]0 IR N S E T P TC RS L C LY L 5}
Let write QX = q(z, 1/0%). Then, by Corollary 3.12 we have, for 2 < p < 2k/(k — 1),
1
‘(nngl) oot ] (T smsel) e
i=1 L‘I)(Dk) i=1 qkeqi ok

i Slx—1
Ak e ,ap1,05)

V4
k
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The dyadic cubes of side length oy, in Q(qk Lo, qi_l, 0k) are contained in an O(o%)-neighborhood

of n 1(Hf,f) which is a smooth k-dimensional surface. Thus,
#{qf-c C q};_l : qf-‘ ek ..., q’,g_l,ﬂk)} < Cak_k
Now, by Holder’s inequality we get

(f1s);

i=1

7| F
( > |szifq;c|p) Pak
k cgk—1 L»

i i

—C, —&— k( -1)
S 03 1% | |
Lp(Qk) i=1

Summation along Q¥ using the rapid decay of the Schwartz function p gives

(frso) ], <ot

i=1 i=1

1 1

(ZlSsnf | ) '

Hence, using Proposition 3.4, Lemma 2.6, and (124), for 2 < p <2k /(k — 1), we have

k 1 .
k _ _8_@_’_@ _
H(]‘[ Safi) soSo 7 B,
i=1 Lr 5244 5_1_2(1 —k—=3_2d—k—1
0 G5 T @ BN

_Cg-d524d_
SogGQsT T ﬂ( €+ B ) lp
with some « > 0 if p > 2(2d —k —1)/(2d —k — 3). Here we have used (100d)~!8 > . We note that

the right—hand side of the above is independent of 7y, ..., t% and there are only O(Uk__cl) many k-tuples
(qk LI qk ~1) satisfying qk L qi ! are transversal. Thus, recalling the definition of 9K £, we

have for2 < p <2k/(k—1)
1 . 44—z i_ —
Mef <07 S5 T 5P (0,€ +02BE ) f I

with some & > 0 provided that p > 2(2d —k —1)/(2d —k — 3). Combining this and (126) we have, for
some o > 0,

R d—2 d

M f<Cs 2 TP (o€ +02BE)IIf - (127)

provided that p > min(2(2d —k —1)/(2d —k —3), 2k /(k — 1)).

Closing induction. Let us set

(i) 25

Since p > ps>2(d —-1)/(d —2) and (100d)_1,8 > ¢, we have

p(m) :max( max min
1<k<m
2 o —B B
B(ok 8) So 6 (B (s)+ak )

for some o > 0. Using (123), we combine the estimates (124), (125), and (127) to get

_d=2,d_ _ _d=2,d_
||sz||p<CZ(ok 0 G0 BR8P fllp + Co S5 T £
k=1
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for some « > 0 as long as p > p(m). The rest of proof is similar to that in Section 2F, so we 1ntend to be
brief. By using the stability of the estimates along ¥ € B (o, N), € £(N), multiplying by 8 E +B
both sides and taking the supremum along v, n and f, and taking the supremum along 8, s <4 <1, we get

Bﬂ(s)<C(Z(fk 1(fk)Bﬁ(s)—l-C Zak

=1 =1

for some o > 0 provided that p > p(m). Choosing o1, ..., 0y,—1 such that C(Zk—l 0 Cl Gk) < % gives

B¢() <Co, C for p > p(m). Therefore, to complete the proof we need only to check that the minimum
of p(m), 2<m <d —1,is ps. This can be done by a simple computation.
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Note in proof

The range of sharp L? bound for the Bochner—Riesz means in Theorem 1.1 was recently improved by
Guth, Hickman and Iliopoulou [Guth et al. 2017] for d > 4.
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