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RATE OF ATTRACTION FOR A SEMILINEAR WAVE
EQUATION WITH VARIABLE COEFFICIENTS
AND CRITICAL NONLINEARITIES

FAGNER DIAS ARARUNA AND FLANK DAVID MORAIS BEZERRA

We study the rate of convergence of global attractors and eigenvalues of the
family of dissipative semilinear wave equations with variable coefficients
Uy + Acu + Afu, = f(u), where A, is the elliptic operator —div(a.(x)V)
with € € [0, 1] and sufficiently smooth coefficients a., and where § (%, 1)
and the nonlinearity f is a continuously differentiable function satisfying
suitable growth conditions. We show that the rate of convergence, as € — 07,
of the global attractors of these problems, as well as of their eigenvalues, is
proportional to the distance of the coefficients |la. — ay|| L~ (@).

1. Introduction and main result

In many theoretical and applied problems, it is important to understand what happens
when the solutions varies parameters in the model, and wave equations with variable
coefficients arise naturally in mathematical modeling of inhomogeneous media
(for example, functionally graded materials or materials with damage induced
inhomogeneity) in solid mechanics, electromagnetism, fluid flows through porous
media (for example, modeling traveling waves in a inhomogeneous gas; see [Egorov
and Shubin 1988; Suggs 2009]), and other areas of physics and engineering.

Nonlinear wave equations arise in quantum mechanics, whereas variants of the
form

uy —divaVu) + g(u, u;) =0

appear in the study of vibrating systems with or without damping, and with or
without forcing terms.

The first author was partially supported by INCTMat, CAPES and CNPq (Brasil), grants 307893/2011-
1, 552758/2011-6 and 477124/2012-7. The second author was partially supported by FAPESP grant
11/04166-5, CAPES, and CNPq (Brasil) grant 552758/2011-6.
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In this work, € € [0, 1], and we consider the following problem associated with
a semilinear dissipative wave equation with variable coefficients:

U+ Aeu+ Au, = f(u), >0, x €L,
(1-1) u(0, x) = uo(x), u (0, x) =vo(x), x€Q,
u(t,x) =0, t>0, x €02,
where @ C RN, N > 3, is a bounded domain with boundary d<2 sufficiently regular,
Ae = —div(ac(x)V), and a¢ is a real function defined in 2 satisfying
(1-2) 0<mg<ac(x) <My forall x € Q.

Moreover, the functions a, € L°°(£2) converge uniformly to ag € L (£2), as € — 0.
Also, we will assume that a, is smooth for all € € [0, 1]. For the system (1-1), let
us consider § € (3, 1).

The operators AS := (AZ%)~! denote the fractional power operators associated
with A.. Provided that A, with domain D(A¢) = H*(Q) N H, (Q) is a sectorial
operator with Reo (A¢) > 0, for any « € (0, 1), it follows by Theorem 1.4.2 in
[Henry 1981] that

o Sinma [ _, 1
(1-3) ATY = AT+ A dn.
0

¢ T
On the nonlinearity f : R — R, which is continuously differentiable and bounded,
we will give conditions under which the problem (1-7) is globally well posed in
HO1 () x L3(2) and it has global attractors, in the terminology of [Hale 1988]
(following closely Theorem 1.1 and Theorem 1.2 in [Carvalho and Cholewa 2002a];
see also [Carvalho and Cholewa 2002b]): if p < (N +2)/(N — 2), there exists a
constant C > 0, independent of €, such that

(- £ 1) = I < Clst —salst ™ + Il 1)
and
(1-5) imsup 2 < o,

Is|>+o0 S

with po, 1 being the first eigenvalue of the Ag in €.

In the rest of this paper, we will use C to denote a generic positive constant
which may change from line to line (unless otherwise stated).

Since the wave equation does not have dissipative character, we have added a
“damping” characterized by the term A%u¢ with § € (%, 1). This additional term
turns problem (1-1) into a sectorial structure (see [Chen and Triggiani 1989]),
however, this gives us an extra difficulty, because it is necessary to perform an
analysis of the rate of convergence of fractional derivatives. Although the sectorial
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structure for (1-1) is preserved when the dissipative term presents the optimal power
6= % (see [Chen and Triggiani 1989]), the convergence (with rate) of attractors is
an open problem for this case.

Related to this issue, in [Arrieta et al. 2013] the authors proved that the difference
lae —aoll L~ () can be used to show the rate of convergence of attractors in the con-
text of the heat equation. Nonlinear absorption problems with variable coefficients
have been considered by many authors; see [Wu and Li 2011; Suggs 2009] and
the references therein. For damped wave equations, several authors have studied
existence of global attractors; see [Babin and Vishik 1989; Bruschi et al. 2006;
Carvalho and Cholewa 2002a; 2002b; Cholewa and Dlotko 2006; Hale 1988; Webb
1980] and the references therein. We can still cite [Bruschi et al. 2006], where the
convergence of attractors was shown, but without explicit rate.

In this work, we will investigate the relationship between the convergence of
functions a. € L>(£2), which converge uniformly to ag € L>(R2), as ¢ — 0T, and
the proximity between the perturbed and limit attractors, as well as the convergence
of the eigenvalues of the operators associated with the problems in (1-1). The
difference ||ac — ao|| L~ (q) will be our measure.

To better explain the results in the paper, we introduce some terminology. Let
us consider the Hilbert spaces ¥ = YO:=L%2(Q), YV? .= H(} (Q),Y':=D(A,) =
{u e HO1 () : Acu € L*(2)} and the Hilbert energy space X = X0=y"2xy
equipped with the inner product

[81[), = [ eomsviocs [ oo

We define the operator A, : D(A¢) C X — X by
SR M IR A
‘Lo Ae A 1Ly A2AT D+ )

D(A) = {[z ] eYBRD L y12 Al 4 e Y“} = X',

and

with Y?® denoting the domain of the fractional power operators associated with
A, that is, Y% = D(Aﬁ). Let us consider Y? endowed with the graph norm
llx]lys = [[ASx||y. Notice that

v Al [Tl [lerer

where Y! x Y? is a dense subset of D(A,).
Notice that the operator A, with domain ¥! x ¥? is not a closed operator, unless
8= %; see [Chen and Triggiani 1989].
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Problem (1-1) can be written as

{wt—kAew:F(w), t>0,

(-7 w(0) = wy € X

with w = [u u;]” and the nonlinear map F : X — Y x Y defined by

Aol=l et )

where f€: HO1 (Q) — H'2(Q) is the Nemytskii operator associated with f.

We will show that these equations define on the space X a nonlinear semigroup
{T:(¢) :t >0} having global attractors A, € € [0, 1], and that the rate of convergence
of the attractors in the sense of the symmetric Hausdorff distance is given by the
order of ||ae —aollgoo(m with 0 € (O, %)

It is worth noting that the dependence of regular attractors on parameters is a very
well-studied and well-understood topic nowadays, especially for the case when the
perturbation is also regular (like in our case). Basically, all the necessary technique
to handle such perturbations can be found already in the monograph of Babin and
Vishik [1989]. However, the problem considered has some interesting peculiarities
in a sense unusual for the attractor theory, namely, the presence of the fractional
powers of the elliptic operator A as well as the necessity to control the dependence
of these powers on the parameter €.

The main purpose of this paper is to give a proof of the following result.

Theorem 1.1. Let {T,(t) : t > 0} be the gradient nonlinear semigroup associated
with (1-7) and let A in X be its global attractor, € € [0, 1]. Then there are constants
C>0andgp € (O, %), independent of €, such that

dist(sde, o) + dist(slo, she) < Cllac — aollfm g
where
dist(A, B) :=sup inf ||x —yllx, A,BCX
xeA YEB

is the Hausdorff semidistance between A and B in X.

We observe that the Hausdorff semidistance between A and B, dist(A, B), ex-
amines how the set A is contained in the set B. For example, if dist(A, B) =0 then
A is contained in the closure of the set B.

The rest of this paper is organized as follows. In Section 2 we show that the
linear semigroups of contractions associated to the problems (1-7) are analytic and
compact, and that their nonlinear semigroups have global attractors s in X. In
Section 3 we see that the distance between the semigroups are proportional to a
power of the distance between coefficients a. € L°°(£2). We study the convergence
of the operators A_Z! to Ay ! We also make a spectral analysis and we prove that the
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convergence of the eigenvalues of the operators associated to (1-7) is proportional
to measure ||ac — aol|z=(@). In Section 4 we analyze the convergence of equilibria.
In Section 5 we study some important properties of the Nemytskii operators F. We
also study the convergence of the operators A — F'(w¢), as w, converges to wy
in X. In Section 6 we analyze the rate of convergence of equilibria. In Section 7
we study the rate of convergence and attraction of local unstable manifolds of an
equilibrium. Finally, in Section 8 we prove the main result of this paper.

2. Functional setting and background results

Our main goal in this section is to prove the well-posedness of problem (1-7)
in X and to ensure that the nonlinear semigroup generated by (1-7) has global
attractor with uniform bounds in X. Our approach is inspired by a similar idea
from [Carvalho and Cholewa 2002a].

Under the assumption above, it is well known that the operator A, is a positive,
self-adjoint operator with domain D(A.) = Y!. Let us denote by {e =< : ¢ > 0}
the analytic linear semigroup generated by —A, on Y, for all € € [0, 1].

According to [Henry 1981], we still have

(2-1) [T 4+ Ad) ey < Cmax{l, |A]71)

for some C > 0 independent of €.

Since A is a sectorial operator with le= 2| vy < C, C independent of €, as a
consequence of the moment inequality (see Theorem 1.4.4 in [Henry 1981]), there
exists a constant C > 0 such that

(2-2) IAZx]ly < ClIAx]Slxlly ™, xeY!,

with 0 < o < 1. The constant C can be chosen uniform with respect to € and «.

In this way, since all operators are selfadjoint, we have that o (A¢) C (—00, ]
for some @ < 0 and, in particular, the set Xy = {A € C: |argA| < ¢}, ¢ € (7/2, 7),
is contained in the resolvent sets of A, for all € € [0, 1]. Consequently,

(2-3) 1A + A g1y SC, &€ Zg,

for some C > 1 independent of €.
We will show that (1-7) is defined on the phase space X, an analytic semigroup.
Proposition 2.1. Let € € [0, 1]. The following conditions hold:
(1) The operator A¢ is closed.

(i1) A is a maximal accretive operator, or equivalently, — A, is maximal dissipa-
tive.

(ii1) 0 € p(A¢) and A¢ has compact resolvent for each € € [0, 1].
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(iv) The semigroup linearly generated by —A. on X, {e™4<' 1t > 0}, is a C°
semigroup of contractions on X.

(v) Ac¢ is a sectorial operator in X with Re o (A¢) > 0. The semigroup of contrac-

—Act

tions {e :t 2 0} is analytic and compact.

Proof. Note that (i) is immediate from the closedness of A, and Aﬁ. For (ii) notice
that, given [¢ (p]T € X!, we have

o (210,

= —(@, P)y1r + (Acp+ Adp, @)y
= (A0, APg)y +(ANAI 9+ 0), 0)y

1/2 1/2
= —(A g, A2@)y + (Ao, AP@)y + (AP0, AV )y,

and hence
Re(Ae[Z ] [z ])X = (AY?9, AV?p)y >0, [z} ex!,

which proves accretivity of Ae.
Furthermore, for each [¢ @]T € X, the linear equation

(2-5) (1+A€)[$]=[£]

is equivalent to the system
{¢ —9 =9,
Acp+o+ Ao =0,

or to the equation
(2-6) Acp+ AP+ =0+ +A)p.

By elliptic theory, it follows that there exists a unique function ¢ € ¥'/2 with
Ac¢ €Y satisfying (2-6) and, therefore, for each € € [0, 1], there exists a unique
[¢ ¢]" € X! solving (2-5).

Concerning 0 € p(A¢), we recall that there exists a bounded inverse operator
AZ': X — X given by

—(1-68 _
A—1=|:A€( )Ael

: P | ecwom,

where A% are bounded inverse operators of A%. Thus, the resolvent operator A_!
is compact, because it takes bounded subsets of X into bounded subsets of X 1
which is compactly embedded in X. This shows (iii).
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The property (iv) that — A, € € [0, 1], generates a C° semigroup of contrac-
tions on X follows from the Lummer—Phillips theorem (see [Pazy 1983]) and the
observations concerning powers of maximal accretive operators (see [Kato 1976]).

Part (v) follows as a consequence of Theorem 1.1 in [Chen and Triggiani 1989].
Finally, compactness of {e=4 .t > 0}, € € [0, 1], is then a consequence of
compactness of the resolvent operators of A, and the proof is complete. (]

Let us denote by I' the boundary of 4. The following statements are valid:

1

(2-7) e A= — | HMI+ AN dn,
271 Jr

(2-8) lle™ 4 gx1 ) < C172e7, 1> 0,

for some C > 0 independent of €.
Also, we have

(2-9) 100 + A0 lx) < he Ty,

C
L+ A

(2-10) I+ A gk < A€ Sy,

C
1+ Al
where C = C(¢) > 0 independent of €.

Under the assumptions (1-4), problem (1-7) is locally well posed in X; see
Theorem 1 in [Carvalho and Cholewa 2002b]. Moreover, under standard dissipative
conditions like (1-5), we have the following result.

Theorem 2.2. Assume (1-4) and (1-5) hold. The nonlinear semigroup {T,(t) :t > 0}
associated with (1-7) is well defined in X and has a global attractor d. in X.
Furthermore,
sup sup |w|x < oo.
e€[0,1] wed,
Proof. Problem (1-7) is globally well posed in X due to Theorem 1.1 in [Carvalho
and Cholewa 2002a], namely, for any w, € X, there exists a unique

we (-, wg) € C([0, 00), X) NC((0, 00), X)

with w(t, wg) € D(A¢), for all t > 0, which satisfies (1-7) and

t
w(t, w) = e~ w§ —I—/ e A F(w(s, w))ds, t>=0.
0

Thus T.(H)wy = u(t, wg), t > 0. To simplify the notation we will denote the
solution wO(z, wg) by w(t, wo).

The existence of global attractors o, in X for semigroups {T¢(¢) : ¢t > 0} and
uniform bounds are also established in Theorem 1.2 in [Carvalho and Cholewa
2002a]. O
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3. Resolvent convergence

In this section we will show the convergence of the resolvent operators Ae_1 to A, !
as € — 0T, and we will establish that the rate of this convergence is |la. — ao ||i/o% -

We recall the convergence of the resolvent operators A ! to Ay I ase — 0%, in
terms of the difference |lac — ao| L~ (). This was proved in [Arrieta et al. 2013],

however, for the sake of completeness, we will sketch a proof.

Lemma 3.1. For h € Y and € € [0, 11, let us consider u¢ € Y' a solution of the
problem

(-1

—div(ac(x)Vu) =h 1in Q,
u=~0 on 0%2.

Then there is a constant C > 0, independent of €, such that

(3-2) lullyr2 < Cllhlly
and
(3-3) lu® —ullyir < Cllhllyllae — aolloo-

Proof. The estimate (3-2) follows from uniform boundedness of a. and Poincaré’s
inequality.

The solution of problem (3-1) can be obtained by a minimization procedure.
That is, if we define

Ae := min {1/ a€|Vu|2dx—/ hudx},
uey12| 2 Q Q

then ). is attained at u€. Therefore,

Aezl/aé|Vu€|2dx—fhu€dx
2 Ja Q

1

(3-4)
:—/ aE|Vu€—Vu0+Vuo|2dx—/ h(u® —u® +u) dx,
Q Q

2

and, evaluating this expression, using that u€ solves Lemma 3.1, we easily obtain

(3-5) ,\6:,\0—%/ aé(x)|Vu€—Vu0|2dx+%f(ae(x)—ao(x))WuOFdx,
Q Q

which implies

(3-6) re =20 < [ (@ = at)lvaPar.
Q
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On the other hand

Ao := min {l/ ao(x)|Vu|2dx—/ hudx}
uey1/2 | 2 Q Q

<lf ao(x)|Vu€|2dx—f hu® dx
2 Ja Q

ot % / (a0 (x) — ac ()| Vs |2 dx.
Q

With this, we obtain

1
he — o = —5 / (@e(x) — ap(x))|Vu|* dx,
Q
which combined with (3-2) and (3-6) gives us

(37 e —hol <llae —aolioy sup lu€ll312 < ClIANG lae — aoll L)
eel0,1]

Finally, the estimate (3-3) is obtained by combining (3-5) and (3-7). ([
Corollary 3.2. The operators AZ': Y — Y2 are uniformly bounded and converge

uniformly to Aal 1Y — YY2, as € — OF. Furthermore, there exists a positive
constant C > 0, independent of €, such that

(3-8) IAZ gy yi2y < C
and
(3-9) IAZ" = Ay gy iy < Cllae — aoll L)

The uniform convergence of the operators A;l (see Corollary 3.2 in [Arrieta
et al. 2013]) implies the convergence of their spectrum. As a matter of fact, the
following result holds.

Proposition 3.3 [Carvalho and Piskarev 2006; Kato 1976]. The following state-
ments hold:

(i) If o € o (—Ay), there exists a sequence €, — 0" and {1, }, with ., € o(—Ag,),
n €N, such that u,, — (g, as n — oQ;

(ii) If for some sequences €, — 0" and 1, — g, as n — oo, with u, € o(—Ag,),
n eN, then ny € o(—Ay).

Moreover, from Lemma 3.4 in [Arrieta et al. 2013], there exists C > 0, indepen-
dent of €, such that

(3-10) 1O+ A) ™" = I+ Ao) gy < Cllae — agllz= @,

for each A € Xy.
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Proposition 3.4. The operators A¢ A= y1/2 5 Y12 e uniformly bounded and

converge uniformly to A, U= y1/2 5 y1/2 g5 € — 0. Furthermore, there exists

a positive constant C > 0, independent of €, such that

(3-11) IAZ gy < C
and

—(1— —(1-6 1/2
(3-12) 1A — Ag g1y < Cllae — aoll o q)-

Proof. Notice that, using (2-2), we get

1—(5—1/2)” ”5—1/2

—(1-6 §—1/2 -1
IAZ TP ullye = 1A ully < CIAZ ullys ullyrd s

where C > 0 is uniform with respect to € and §. Thus (3-11) follows by (3-8).
Before we prove (3-12), let us observe that (2-2) and (3-11) imply

3-13) (A7 = AG )Rl
_ ||Ai/2(A;(1*‘” _ AO—(I—S))h”Y
S CIAATID = A7 D)2 A 707D — A )a)y?
SCIAATI™D = AT 2AUAZ DR + 145 01
< C||A5(A€_(]_8) A —(1— 6))h”1/2

for some C > 0 independent of €, and forany h € Y.
To prove (3-12), it follows by (3-13) that it is sufficient to obtain an estimate for
the norm ||A€(Ae_(l_5) — Aa(l_s))”g(y). In fact, it follows by (1-3) that

. sm(mx)

(3-14)  AY—A)" = AL+ AT = (AT + Ag) " dn.

Using (3-14) (with ¢ = 1 — §), we can deduce
(3-15)  I1AAZ" = ATl
o
< / |27 IALGT + A" = BT + A0) gy I
Notice that the resolven(i identity
(3-16) (WM +A) ' —AI+A)7!
= +A)T'T = I+ AT+ Ag) ']
=4+ A)T IO+ Ag)— W+ AT + Ag) ™!
= +A) 7 [Ag— AT + Ag)~!
= A+ A) AT = AG AT + Ag) ™!
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holds, and, by sectoriality of A, we have
(3-17) A + A ey <C, foralle €0, 1],

where C > 0 is independent of €.
Substituting (3-16) into (3-15), we get

(3-18)  IA(ATI™D — AZ) gy

o0
< f IVTTOAAOT+ AT AT — Ay TAGOT + Ao) ™l eryd IA|
0
* 1
< / TENAY T+ AT AT AT = A TAGT 4 Ao) ey d Al
0

where y € (1, 2) is a constant to be chosen.
Since Y172 is continuously embedded in Y I+=y), by estimates (3-9) and (3-17),
we can deduce from (3-18) that

(3-19) AAZTD — A7) gy

o0
< Cllac — apll =@ / TAONAY AL 4 A g ryd ],
0

where r € (y — 1, 1) is a constant to be chosen.
From (2-2) and the fact that Y is continuously embedded in Y”, it follows by
(3-19) that

(3-20) [ AAZTD — AZ ) gy

C||ae—ao||L°0(Q)/ MDA AT T+ A0
X NALOL+ A Ny dIi

cnae—aonmm/ O NACT + AT I I+ A gy dlal.

Using (2-1) and (3-17), we get by (3-20) that
32D [AcA7 " = Ag ) gy

o
< Cllac=anllimey [ W ODIGT+ A0 1 i
0

0,0]
< Cllac=anllimey [ WD max(1, i)l
0

1 [e'e)
<C||ae—aollL°°(Q)(/ L2 d A+ / |x|—2+5+y—’d|x|).
0 1
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Taking y and r sufficiently close to 1 such that § +y —r < 1, we can conclude
by (3-21) the existence of a positive constant C, independent of €, such that

(3-22) 1A(A7 ™ = Ag ™) lgy) < Cllae —aollLo-
Finally, combining (3-13) and (3-22) we obtain the desired estimate (3-12). [J

Before we prove analogous result of the last proposition with A, instead of A,
we present the following general version of the moment inequality (see [Sobolevskii
1961]):

(3-23) lAcwlx < Cllwlly P I1A%wl*,  we D(AY),

where the constant C > 0 is independent of €.

Proposition 3.5. The operators A;l : X — X' are uniformly bounded and converge
in the uniform topology to A ' X - X!, as € — 0. Furthermore, there exists a
positive constant C > 0, independent of €, such that

(3-24) IAZ Mlepx x1) < C

and

(3-25) IAZ — ATY) < Cllac — aoll V2
€ 0 llex,xty < Cllae 00||LOO(Q).

Proof. For g, h € L?(2) and € € [0, 1], let [¢. (pe]T be the solution of the problem

W[E1=[1) oo

By (1-6), there exists C > 0, independent €, such that

1040 el g R D | W

and by (3-23), we get

I =Tl

(11— —(1-6 _ _
= IA7 g — AT Vgl + AT = AG Ry
—(1— —(1-6 —(1— —(1-6
SCIAV2 AT e — AT )y + IAZ VR — A PRy

Thus, by Corollary 3.2, we conclude that

I 1-[]

1/2
o SCAgllyre+ Iklly)llae = aoll < g

8 1/2
=[] o
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where C > 0 is independent of €. ]
The next result ensures convergence of the spectrum of operators —A..

Proposition 3.6 [Carvalho and Piskarev 2006; Kato 1976]. The following state-
ments hold:

() If no € 0 (—Ay), there exists a sequence €, — 0" and {1, }, with ., € o(—Ag,),
n € N such that (i, — o as n — oQ.

(ii) If for some sequences €, — 0% and p, — o as n — 0o, with u, € o (—A,),
n €N, then (g € o (—Ap).

Now let us establish the result which treats convergence for resolvent operators.

Proposition 3.7. Foreach ¢ € (7w /2, i), there exists a constant C = C(¢p) > 0 such
that

_ _ 1/2
sup (A1 + A~ = T+ Ao)Mlgx x1) < Cllae — aoll )= -
AeEd,

Proof. We can see that
(3260 (M +A) ' = —A)) ' =M +A) T ALAY — AT A + Ag) !
=AM+ A) A — AT AG(M + Ag)
Notice that, for A € ¥y C p(—A¢), we have
AcQI+A) T = [+ A)A T =nA =117,
and, therefore,
(3-27) lAc( T+ A) gy < C, 1€ 2y,

for some C > 0 independent of €.
By (3-25)-(3-27), we have the existence of a constant C > 0 (independent of €
and of A € Xy) such that

~ ~ 1/2
I+ A" = A+ A0) lgx.x1y < Cllac _a0||L/°°(Q)‘ -

To finish this section, we will make a spectral analysis, where we will give a
characterization, as well as a rate of convergence, as € — 0, for the eigenvalues
associated with the operators A..

Let y be a closed, rectifiable, simple and oriented counterclockwise curve in
p(—Ap) around pp € 0(Ap) which has index 1 relative to y. From part (ii) of
Proposition 3.6, it is easy to see that there is an €,, > 0 such that the trace of y is in
p(Ae), for € € [0, €,]. We define the spectral projection in X

1
Qe (o) = =— / W+ A0 an,
271 y
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and, for i € C such that (1/(27i)) f y (A — )~ dxr =1, we define the generalized
eigenspace associated with u, W(u, —A¢) = Qc (o) (X), € € [0, €, ]. Furthermore,
Q¢ (o) is compact and dim W (e, —A¢) = rank(Qc (o)) < o0.

Related to the rate of convergence, the following result holds.

Proposition 3.8. The family of operators Q¢(1o) : X — X converges uniformly to
Qo) : X — X, as € — 0T. Moreover,

(3-28) 1Qe (o) = Qo(no)llx) < Cllac — aoll [~ g
and
(3-29) 1A Qe (o) — Ao Qo(10) l#x) < Cliae —aoll = q)-

where C > 0 independent of €.

Proof. Since
1 _ _
Qe (ko) = Qo(uo) = ﬁ/[(“ +A)™ = I + A dn,
¥
we can use Proposition 3.7 to guarantee the estimate (3-28).

To prove (3-29), it is sufficient to use (3-26) and (3-28). O

Remark 3.9. If 1 is an isolated eigenvalue for Ao, we may define Q. (1) as above
and it follows from Proposition 3.6 that there exists 1., which is an eigenvalue of
A, such that g, — o, as € — 07. Hence Qc(110) = Qc(tte). We still have from
Proposition 3.8 that

1Qe(116) Qok0) — Qo(o)lwx) < Cllae —aoll g

and that O, (ue) Qo(o) is an isomorphism between R(Qo(io)) and R(Qe(ite)).

The next result deals with the characterization and rate of convergence of the
eigenvalues associated to operators Ae.

Theorem 3.10. For each € € [0, 1], the eigenvalues of the operator A, are given

by
Jden — 1,

Mg" +i ,
2 2

where jie n, n € N, denotes the eigenvalues of the operator A.. Furthermore, if

Ker(Ay, I — Ao) = R(Qo(Ag,)). then

(3-30) A, = neN,

+ + 1/2
hE, = AT, < Cullac —aoll 2 ) neN,

for some constant C,, > 0, independent of €.
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Proof. To study the spectral problem for the operator A, we consider the equation

(3-31) Ae[z]:k[z],
that is,
(3-32) Ao —AAp+AH=0,

whose solutions are the eigenvectors {¢¢ ,} of Ac:

(3-33) Aoen — U Aen + Menden =0.

In this way, the corresponding eigenvalues {)\;'fn} of A¢ are the solutions of the
equation
32 = pre pht ten =0

and they are given by (3-30).

Moreover, by the above remark and Proposition 3.8, we have that, for each
€ > 0, there exists [¢ ¢]” € R(Qo), lll¢ ¢]"|lx1 =1, such that Q.[¢ ¢]” is an
eigenvector of A, associated to A and

Mzt,n - )‘z)tn|
+ ¢ + ¢ + ¢ + ¢
(3-34) S ) XE’”QO[ 10 ] B ké’"Qe[ %) ]Hxl + ‘ AE’”QG[ @ ] B AO*”QO[ 10 ]“Xl
(335) < Cllac—aol ;% g
and the proof is completed. U

4. Rate of convergence of resolvents of linearized operators

In this section we will study the rate of convergence of the resolvents of operators
which corresponds to linearizations of (1-7) around equilibria.

It is known that the Nemytskii map f¢(u) = f(u), u € Y'/2, is Fréchet
continuously differentiable. Moreover, if {u.} converges to ug in ¥'/? and 0 ¢
o (Ao — (f9)(uo)), then ((f¢) (ue))AZ! converges to ((fe)/(uo))Aa1 in the uni-
form operator topology of £(Y); see, for instance, [Arrieta et al. 2013]. Hence the
Nemytskii map F is Fréchet continuously differentiable. Moreover, if u. — ug in
X and 0 € 0 (Ag — F'(ugp)), then

4-1) (F'u)A" — (F'(up)Ay' in £(X).

Lemma 4.1. We assume ue — ugin X and 0 & o (Ag — F'(ug)). Then there exists
€9 > 0 such that the net of operators

{ALJ2(Ac — F'(ue)) ™' e €10, 17}
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is uniformly bounded in £(X) and
IAL/2(Ac = F'(ue)) ™" = Ab/2(A0 — F'0)) Ml < Cllac — aoll = g
where C > 0 is independent of €.

Proof. The proof follows from the identity
AP (A= Fu)™ =AU = FluAZH™
and by (4-1). O

5. Rate of convergence of the linear and nonlinear semigroups

Since the operators A, € € [0, 1], are self-adjoint and AZ! converges uniformly to
Ay "as € = 0T, for each & < A? (k(l) the first eigenvalue of Ag), there exists C > 0,
independent of € € [0, 1], such that

(5-1) le A gy < Ce™ 't 12, t>0, ecl0,1].

Theorem 5.1. If6 € ( ] and o < A?, there exists C > 0, independent of €, such
that

(5-2) lle™ ! — e 4"l gx) < Ce™*[lae — apllF gyt~ /7

forallt > 0ande € [0, 1].

Proof. Considering the linear semigroup

1
oAt — 5 e)‘t()»I+A )" tdn, eelo,1],
i

where I' is the boundary of sector Y w¢ ={r e C:larg(h + w)| < ¢} with
/2 < ¢ < m, oriented in such a way that the imaginary part of A increases as A
runs in .

The estimate

(5-3) le™ A — e8| gxy < lle™ A |lpex) + le ™2 || pxy < Ce ¢~ 1/2

follows by (5-1).
On the other hand, using Proposition 3.7, we have

(5-4) lle™ 4" — =4 g x) < Ce™ lae — apll o gyt ™"

Therefore, for 6 € (0, %], we obtain

”e—Aet _ a(l— 29)1 —1/2(1-20) —20

—a (2 2
(5 o H)IHae —a0||L900(Q)t
—(1/246)

—A

e M gx) < Ce™
—at 26

< Ce "ae _aOHLOO(Q)t

where C > 0 is independent of €. U
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Theorem 5.2. Let [u. v.]",[u v]’ € X, and 0 € (O, %) Then there are positive
constants C and Ly such that

forallt > 0.

ol J-me ] <cerm ([ ][4 )] ot

Proof. For t >0 and [u. v.]” € X we have

Te(t)[zt): ] :e_Af’[z:]—i—/ote_Af(’_s)f(Te(s)[Z: ]) ds, eelo,1],

and therefore

55) |

ol [=nelL ]l

el ol [ s (ol

— e_AO(t_S)f(To(s)[ u ]) H ds.
v X
From (5-1) and (5-2) we get
o fe [ ] =]l
Ve v1lx

< 17240 H [ Ue ] _ [ u ]“ +Cla _a0||20m —(1/240)

= Ve v dlix ¢ L)
We still have

5 /Oz He,Ag(tfs)f(Te(s)l: Z: ]) _ e*AW*S’f(To(s)[ Z ]) Hx ds

t
<CLf/ (t — )" 1/2eal=9)
0

ZRETR R

t
+ Cllac — aoll 7% (q) / (1 —s)" 1A= gy,
0
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Substituting (5-6) and (5-7) in (5-5), it follows that
u u
.ol " ]-no["]|
Ve v lilx
Ue u 20 ) —(1/2+46) j—at
< - - o]
<c(|[5 1= [0 Mt o= ot Jemee

t
+CLy f (t —s) "1/ 2em )
0

TRETRR

€

Thus the singular Gronwall inequality (see Lemma 7.1.1 in [Henry 1981]) guarantees
the existence of a constant L > 0 such that

ol ]-nol]

I,

Lt ,—(1/2+6) Ue u 0
ccetr ([T ] [V]], + tac—alfvm). 8

6. Rate of convergence of the equilibria and of the linearizations

Now we will work to control the behavior of equilibria in terms of ||a. — a0||¥.§ -
First, we will give the definition of equilibrium of problem (1-7).

Definition 6.1. The equilibrium solutions of (1-7) are the functions that solve the
stationary

(6-1) Acw® =FWw*), €€][0,1].

For each € € [0, 1], we denote by €, the set of the equilibrium solutions of (1-7). We
say that an equilibrium w¢ of (1-7) is hyperbolic if the spectrum o (Ac — F'(w5))
of Ac — F'(w?) is disjoint from the imaginary axis.

We start by proving the upper semicontinuity of the family of equilibria.
Proposition 6.2. The family {€. : € € [0, 1]} is upper semicontinuous at € = Q.

Proof. Since €. is contained in o, sup{||w€| x : w® € €., € €[0, 1]} < oo. Using the
fact that F : X — Y x Y is bounded, for each w¢ € €., we have that w¢ = A;l F(w),
and the result follows from the uniform convergence of AZ! to Ay L g

The proof of lower semicontinuity requires additional assumptions. We need
to assume that the equilibrium points of (1-7) are stable under perturbation. This
stability under perturbation will be given by the hyperbolicity.

Proposition 6.3. Any hyperbolic point of € is isolated.
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Proof. We note that w, € € is a solution of (6-1) if and only if w, is a fixed point
of

W(w) := (Ag— F'(wy) " (F(w) — F'(w)w).

If we show that, for some r > 0, ¥ : B,(w,) — B,(w,) is a contraction, where
By (wy) :={w e X : |lw—wy|x <r}, then wy is a unique element in B, (wy) N€
and, consequently, is isolated. In fact, letting » > 0 and u, v € B, (u,), we observe
by (4-1) that

19 @) =W @)lx <A = F'(w) ™ o |(F ) = F(0) = F'(wi) (4 — ) | x

<

SCriu—vlx.

Thus, choosing r such that Cr < 1, we have W is a contraction. We can see that,
if v € By (wy), then [|[W(v) —wyllx = W) — W(wy)llx < Cllv—wslx <r, for
some constant C € [0, 1). Then W (B, (w4)) C B,(w). This implies that ¥ has a
unique fixed point in B, (w,) and the proof is complete. O

Corollary 6.4. The set €y has at most a finite number of hyperbolic points.
Proof. It follows directly of the compactness of €é.. ([l

Now we are going to study the convergence properties of resolvent operators of
the form (A + V.)~!, with V. € £(X!, X). This is because we are interested in
comparing the resolvent operators of the linearization around equilibrium.

The convergence of resolvents of A + V; follows from the convergence of resol-
vents of A, (see Proposition 3.5) and the lemma below, whose proof is immediate.

Lemma 6.5. The operator Ac + Vy, € € [0, 1], satisfies the identity
(6-2) (Ac+ Vo) ' —(Ag+ Vo)~ !
= 1[I — (Ac + Vo) " "Vol(AZ! — AgHIT — Vo(Ag + Vo) 1.

Theorem 6.6. Let us consider wy. a hyperbolic of €g with 0 & o (Ag — f'(wy)).
Then there exist €, > 0 and r > 0 such that problem (1-7) has exactly one equilibrium
solution w¢ in Br(wy) i={we X : |lw—wilx < r} for € € [0, €1]. Furthermore,
lwi —wyllx < Cllac — a0||1L/£(Q) for some C > 0 independent of €.

Proof. The hyperbolicity of w, means that o (A — f'(w,)) is disjoint from the
imaginary axis. Thus, by Lemma 4.1, we can guarantee the existence of a constant
C > 0 such that

I(Ae = F'(w) g < €. e €l0, 1.
We have that w® is a solution of (6-1) if and only if it is a fixed point of the map

W (0) := (Ac — F'(w) " (F(w) — F'(wy)w).
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From Lemma 4.1, we get that Ai/ Z(Ae — F’(wy))~! converges uniformly to
A)* (Ao — F'(w,))~", which implies
Y, (wy) = Yo(ws) in X.
Now we will prove the existence of r > 0 and €; € [0, 1] such that W, is a
contraction of B, (w,) = {we X : |lw— w4l x <r} into itself, uniformly in [0, €;].

In fact, first we will see that W, is a contraction map. For this, we take u€ and v€ in
B, (w,). In this way,

[We (u) — We (v) Il x

= [[(Ac — F'(w,)) "' [F(u®) — F () — F'(w) (u® — v)] | x

<A = F' () llgex x|l F ) = F ) = F' () (€ = v) 1

= 1A' = F'w) ™ A D g x|l F ) = F(0€) = F'() ' = v) | x,
and, according to Proposition 3.5 and (4-1), there exist C > 0 and €; > 0 such that
(6-3) |We(®) — W (v)|lx1 < C8|lu® —v€|x, foralléd>0andalleel0,e].

Therefore, choosing § such that C§ < a < 1, it follows that W, is a contraction as
claimed.

Let us show now that W, (B, (w,)) C B, (w,). Taking u€ € B, (w,), we obtain
by (6-3) that

(6-4) [We () — willx < |We @) — We (W) [l x + [ We (wi) — wiellx

Sallu® —willx + | We(wy) — willx

<ar+ ||Ye(wy) —wy|x, forallee(0,e€].
It follows from Lemma 4.1 that there exists €; > 0 such that

(6-5) [We(wy) —wyllx <r/2, foralleel0,e].
Combining (6-4) and (6-5), and considering a < 1/2, we deduce that

[We(u®) —wyllx <r, foralleel0,¢],

and, therefore, W, : B, (w,) — B, (w,) is a contraction, for all € € [0, €;]. Hence,
there exists a fixed point of W, in B, (w,), which we will call wg.
Finally, we will find an estimate of the difference w{ — w, in terms of |lac —
1/2
ap ” L/OO(Q) .
Observe that wé = W (w$) and w, = Wo(w,). If we denote F'(w,) = Vo, we
have

(6-6) [[wE — wallx < 1((Ac + Vo) ™' — (Ao + Vo) " DIF (we) + Vowt]
+ (A + Vo) T [F (ws) — F(wy) + Vo(ws — w,)]| x.
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Identity (6-2) and Proposition 3.5 give us
- — — — 2
(6-7) I1(Ae+V0) ™' —(Ao+ Vo) Mz <CIAT = Ay e < Cllac—aoll = g

where the constant C > 0 is independent of €.

On the other hand, denoting z§ = F(wg) — F(ws) + Vo(w; — w,) and using the
differentiability of the map F : X — Y x Y (see (4-1)), we get that, for every r > 0,
lzellx < rllwg — wyllx. Hence,

(6-8) (Ao + Vo) "' z5llx < rll(Ao+ Vo) e llws — wyllx.
Substituting (6-7) and (6-8) in (6-5) and choosing r > 0 such that r||(Ag +

Vo) Hlew) < 1/2, we obtain

1/2
s —willx < CIF @) + Vowslixllac — aoll}Z g, + 3 1ws — wilx.

which, combined with the fact that f and its derivative are limited, allows us to
conclude

1/2
lws — wsllx < Cllae —aoll}< - O
Remark 6.7. Notice that, by assuming that elements of €y = {wi*o, R w:’o} are
hyperbolic, we have that the points of €, = {w}f, .., wp€), with € € (0, 1], satisfy

the estimate [|w}€ —wi0|[x < Cllac —aoll= g, We still have by (4-1) that, writing
Ve = F/(wf) with w¢ € €., Ve converges to Vj in the uniform topology.

Lemma 6.8. There exists a constant C > 0, independent of €, such that
IVeAZ = VoAg lacx) < Cllae —aoll~ g
Proof. The estimate follows by the decomposition
VAT = VoAG' = Ve(AZ = AgH + (Ve = V) A
(3-25), and Theorem 6.6. O

The next result shows an analogous property found in Proposition 3.5 with
Ac¢ + Ve instead of A.. This will be important in the analysis in the next section.

Proposition 6.9. Let us consider A=A+ V. foralle €10, 1]. IfO € ,o(;lo), then
0 € p(Ap), for all € € (0, 11, and the following identity holds:

69 A-'—Aj!
=(A7 = AHU+VOAGH T = AT U+ VoA Y T (VAT VoA T+ Ve ATH
Furthermore
_ 1/2
(6-10) A" = A5 e < Cllae — aoll = q)-

for some C > 0 independent of €.
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Proof. The first part follows from Proposition 2.1. The identity (6-9) is immediate,
and (6-10) follows using (6-9), Proposition 3.5, and Lemma 6.8. [l

The last proposition enables us to prove similar results as Proposition 3.6,
Proposition 3.7, Theorem 5.1 and Theorem 5.2 for A + V instead of Ae.

7. Rate of convergence and attraction of local unstable manifolds

The main aim of this section is the proof of the existence unstable local manifolds
as a graph of a Lipschitz function, its convergence, and exponential attraction.

For each € € [0, €1], let us consider w¢, to be an equilibrium solution for (1-7). We
assume the existence of a constant C > 0 such that [|w§ —w.||x < Cllac —aol| ]L/é(ﬂ)’
for all € € [0, €], and that w, := w? is hyperbolic. To deal with a neighborhood of
the equilibrium point wg, we rewrite the problems (1-7) as

(7-1) 4+ A = Fu +ws) — F(ws) — F'(wh)us,
where z¢ =u®—w¢ and A=A — F'(w¢). With this, one can look for Proposition 3.7
with A, instead of A..

Let y be a smooth, closed, simple, rectifiable curve in {z € C: Rez > 0}, oriented
counterclockwise and such that the bounded connected component of C\{y} (here
{y} denotes the trace of y) contains {z € o(—Ap) : Rez > 0}. From part (ii) of

Proposition 3.6, there exists €; > 0 such that {y} C p(—Ac) forall € € [0, €;]. We
define Q. by

_ 1 _
Oc=— /(u —A)'dx, foralle €0, ¢].
271 y

The operator A, is self-adjoint and there exist 8 > 0 and C > 1 such that

le ' Ocllsx) < Ce ', forallr >0andall € € [0, ]
and B
lle™ " (I = Q) llex) < Ct~2e P, 1> 0.

Using the decomposition X = 0. X® (I — 0.)X (the solution z€ of (7-1) can
be decomposed as z¢ = Q.z¢ + (I — Q.)z°), we rewrite (7-1) as

d — _ _ _
d_(QeZG) + Ac QEZE = He(QeZG» - Qs)Ze)a
t
(7-2) J
E[(l - Qe)ze] +Ae(1 - ée)ze = Ge(éezea - QE)ZE)9
where

(7-3)  He(Qez, (I — Q)Z)
1= Q[ F(Qezf +(I— Q) +ws) — F(ws) — F' (wE)(Qezf + (I — Q)z)],
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and
(7-4)  Ge(Qezf, (I — Q)Z°)
== QIF(Qez + (U — 0z +ws) — F(wg) — F'(wi)(Qez + (I — 0)z)].
The functions H, and G are continuously differentiable with
H:(0,0) =G.(0,0)=0

and H!(0, 0) =0=G.(0, 0) € £(X). For simplicity of notation, we write »¢ = Q. z¢
and 9€ = (I — Q.)z¢. Hence, given p > 0, there exist €; > 0 and > 0 such that if
lollg,x + 191l _g,x < and € € [0, €], then

(7-5) IHe (@, 9 g x <o and G, )l y_p.,x <o
(7-6) | He(@", 9) = He(@", )l g x < pll’ =g, x + 19 =9 ly_g,x)
and

(T7) 1Ge@ . 0)=Ge@. 5l yp,yx <PUI =0l x+ 19 =Dl _g,x)-

Considering the coupled system (7-2), we can show an unstable manifold theorem
using similar arguments to those in the results of Chapter 6 in [Henry 1981].

Theorem 7.1. There exists a map s : 0cX — (I — Qo)X such that the unstable
manifold of wg, is given by

W' we) ={(®,9) € X: 9 =sS(0), w € Q:X}.
The map s; satisfies

llscll:== sup lsg(@)llx <C, [Isi(@) —si(@lx < Cllo—dlg x
weQ X

where C > 0 is a constant independent of €, and for 6 € (0, %) there exists a C > 0,
independent of €, such that

0 20
(7-8) llss = sl < Cllae — aollz oo g)-

Furthermore, there exists p1 > 0, C > 0 (independent of €), and ty > 0 such that,
for any solution (0 (t), V€(t)) € X, t € [tg, 00), of (7-2), we have

(7-9) 19€(t) —sE(@ (1)l x < Ce P19 (19) —sE (@ (o))l x,  for all t > 1.
Proof. We consider the set
Te=1{s:0X' > (I = Q)X :[Isl < C, [Is(@) —s(@)x < Cllo—allg,x}-

It is not difficult to see that (X, || - ||) is a complete metric space.
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Given s € ¥¢ and n € 0.X, we denote by w¢(t) =¥ (¢, 7, 1, s) the solution of

{a)f(t) + B (t) = H (0 (1), s(@f (1)), t<Tt
o(T) =1.
We define ¥, : ¥, — X by

‘PE(S)n=f eACOG (0 (6), 5 (0 (§))) dE.

According to Theorem 7.1 in [Arrieta et al. 2013], we can deduce that W, is a
contraction. Therefore, there is a fixed point s{ = W(s) in Z..

Now we shall prove that the graph of s {(@¢, s5(0°)) : @€ € 0. X} is invariant
for (7-2), in the sense that initial data for (7-2) in {(®°, s{(0°)) : ©° € 0.X) lead
to solutions in this space. In fact, we take (@, 9;) € W*(w5) (5 = s5(w)). We
denote by w(¢) the solution of the initial value problems

d — _
E(Qezg) + Ac QeZE = He(wév s:(we))’
o (0) = o,

where 7€ = 0 + € € Q. X ® (I — Q) X. This defines a curve (0 (t), s$(w(1))) €
WH(ws), t € R. Also, the unique solution of

d — _ _
E[(I — Q) ]+ Ac(l = Q)z° = Ge (o, 55 (),

which remains bounded as t — —o0, is

t
ﬁmzu—ammzf M ImLNTOG (w5 (6), sE(@(6))) dE =55 (1))
—00

Therefore (w5 (), s¢(w(¢))) is a solution of the system (7-2) through the point
(wy, V), proving the invariance of the graph of s.

To show (7-8), we can proceed as in the proof of Proposition 6.1 in [Arrieta et al.
2009].

Finally, the proof that the graph of s{ is the unstable manifold that attracts
exponentially, uniformly in €, that is, the inequality (7-9) holds, follows by similar
arguments to those in the proof of (A.8) in [Bruschi et al. 2006]. U

Now we are able to prove our main result.

8. Proof of Theorem 1.1

The purpose of this section is to emphasize the proof of our main result. For this,
we return to Theorem 1.1 to establish its proof.
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Proof of Theorem 1.1. This proof follows by Theorem 5.2, Theorem 6.6, and
Theorem 7.1 jointly with Theorems 2.1 and 2.2, and Corollary 2.1 in Chapter 8 of
[Babin and Vishik 1989]. U
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THE BRIN-THOMPSON GROUPS sV ARE OF TYPE F

MARTIN G. FLUCH, MARCO MARSCHLER,
STEFAN WITZEL AND MATTHEW C. B. ZAREMSKY

We prove that the Brin-Thompson groups sV, also called higher-dimen-
sional Thompson’s groups, are of type F, for all s € N. This result was
previously shown for s < 3, by considering the action of sV on a naturally
associated space. Our key step is to replace this space by a subspace s X that
is easier to analyze.

Recall that a group is of type F if it admits a classifying space with finitely
many cells in each dimension. Well-known examples of groups of type F, include
Thompson’s groups F, T, and V. Some generalizations of V were introduced by
Brin [2004; 2005] and shown to be simple. We denote these groups sV, for s € N,
with 1V = V. These groups are usually termed higher-dimensional Thompson’s
groups or Brin—-Thompson groups. All of the groups sV are known to be finitely
presented [Hennig and Matucci 2012], and Kochloukova, Martinez-Pérez, and
Nucinkis [Kochloukova et al. 2013] showed that 2V and 3V are of type Fo,. We
prove that this result extends to all dimensions.

Main Theorem. The Brin—Thompson group sV is of type Foo for all s.

Fix some s. There is a natural poset % associated to s V. The realization ||
of this poset is contractible and the action of sV is proper but not cocompact. To
prove the Main Theorem it suffices to produce a cocompact filtration of || whose
connectivity tends to infinity. The tool to study relative connectivity is discrete
Morse theory. This was carried out for s = 2, 3 in [Kochloukova et al. 2013].
However, for larger s this space quickly becomes cumbersome.

We therefore consider a subspace s X of |%1|, which we call the Stein space for
sV. As before, the Stein space is contractible and the action is not cocompact. The
advantage of the Stein space is that the Morse theory becomes easier to handle.

In Section 1 we recall the definition of sV. The Stein space sX is defined in
Section 2 and some basic properties are verified. In Section 3 we analyze the
connectivity of the subspaces in the filtration and deduce the Main Theorem.

The second author was formerly known as Marco Schwandt.
MSC2010: primary 20F65; secondary 57Q12.

Keywords: Thompson’s groups, finiteness properties.
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1. The Brin-Thompson groups

The elements of the Brin—-Thompson group sV can be described as dyadic self-maps
of s-dimensional cubes. We will first give a brief intuition for these maps, and then
delve into some formalism.

To get an intuition for the elements of sV for arbitrary s, recall first that elements
of Thompson’s group V =1V can be thought of as left-continuous, piecewise linear
maps from the unit interval [0, 1] to itself, where the slope of any linear piece is a
positive dyadic rational. An equivalent description of such an element is obtained
as follows: First divide the unit interval representing the domain into two halves
and iterate this procedure by further subdividing some of the resulting pieces. Then
similarly cut up the unit interval representing the codomain into the same number
of pieces as the domain, and finally identify the pieces of the domain and codomain
via a permutation. Note that the intervals identified in the last step will usually have
different lengths. For more details see [Cannon et al. 1996].

To describe elements of sV, we no longer think of the unit interval but the unit
s-cube [0, 1]°. The unit s-cube can be halved by dyadic hyperplanes in s different
directions, as can any iterated piece obtained this way. As with V, an element of
sV can be described as a sequence of halvings of the domain and codomain and an
identification of the resulting pieces by a permutation. Again the identification will
affinely deform the individual pieces. Alternatively we can describe an element by
a dyadic map from the s-cube to itself. A sequence of halvings of the s-cube will
be modeled by “dyadic coverings”. To get an intuition, the reader might want to
look at Figure 1 (the map f] represents an element of 2V). It may also be helpful to
read Section 1 of [Burillo and Cleary 2010], which additionally details the paired
trees model for elements of sV.

1A. Dyadic maps and the group sV. We now describe more formally the notions
needed to define the group sV, and also a certain poset %1, which will then be used
to define the space s X for our main argument.

A real number is called dyadic if it is of the form k /2! for some k € Z and | € Nj.
We denote by I the subspace of [0, 1] of nondyadic numbers. By a dyadic interval
we mean a set of the form [k/2!, (k+1)/2'1N T with k, I € Ny, and the length of the
dyadic interval is defined to be 1/2'. A bijection A — B between dyadic intervals
is called a simple dyadic map if it is affine of positive slope. Note that this slope
will necessarily be a power of two.

In general we consider the unit s-cube /* (or rather, the set of nondyadic points
in the unit s-cube), which is the s-fold product of /. A brick is a subset C of I°*
that is a product of s dyadic intervals, called the edges of C, and the volume of C
is the product of the lengths of its edges. Note that the volume of a brick is always
a power of two. A dyadic covering is a finite set of bricks that disjointly cover I°.
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Note that by our definition the set I does not contain any dyadic numbers.
For a natural number m, denote by /°(m) the disjoint union

I'(m):=Byu---UB,,

where each B; is a copy of I¥. Note that /° is the same as /°(1). We call B; the
i-th block of I°(m). A covering U of I*(m) is called dyadic if it is a disjoint union
U= U---LU,, where U; is a dyadic covering of the block B;. We denote by
Im ={Bi, ..., By} the trivial dyadic covering of I°(m), in which the bricks are
just the blocks themselves.

Observation 1.1. The set of dyadic coverings of I°(m) is a lattice with respect to
the refinement relation.

Proof. Existence of joins (that is, coarsest common refinements) as well as existence
of a unique minimum (namely, 7 ,,) are clear. The statement now follows from
standard order theory. O

Let AU and V" be dyadic coverings of I°(m) and I°(n), respectively, and let
f: I*(m) — I°(n) be a map. We say that the pair of dyadic coverings (U, V) is
compatible with f if for every C € AU, f|¢ is a product of simple dyadic maps and
f(C) € V. Less formally, this means that every brick in the domain maps in an
affine way to a brick in the codomain. If such a pair of dyadic coverings exists,
then we say that f is a dyadic map. It is easy to see that composition of two dyadic
maps is again a dyadic map, that every dyadic map is invertible, and that the inverse
of a dyadic map is dyadic.

There is a combinatorial description of dyadic maps. If f: I°(m) — I°(n) is
a dyadic map and (U, U;) is a compatible covering, then f induces a bijection
of dyadic coverings U; — AU,. Conversely, every bijection of dyadic coverings
AUy — U, induces a dyadic map I¥(m) — I°(n).

Note that two bijections U; — V1 and U, — V7, induce the same map I*(m) —
I¥ (n) if and only if there are common refinements U and V" such that the induced
bijections U — V" coincide.

Definition 1.2. The Brin—-Thompson group sV is the group of all dyadic self maps
of I® with the multiplication given by composition, gh := g o h.

1B. The poset 1. In order to define the poset % on which sV acts we need some
more notation.

Denote by QPm n the set of all dyadlc maps f: I°(m) — I*(n), so for example
9]’1 1=sV. Let % be the union of the @m " where m and n range over all positive
integers. Also denote by 9]’ the subset of % where the domain of the maps consists
of m blocks.
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Figure 1. An example of a dyadic map f;: I*(1) — I*(1) and
a dyadic map f>: I?(1) — I?(2), obtained from f; by splitting
along a horizontal line. The map f, is equivalent in %; to the one
where the blocks on the right are interchanged.

There is a natural action of sV on & given by precomposition: f& := f o g for

g esV and f € 97’1 For each positive n there is also an action of the symmetric

group S, on Q’m n by permuting the blocks of the codomain. We denote the quotient

Prm.n/Sn bY Prm.n. In other words, an element of %, ,, is obtained from @m n by
forgetting the order of the blocks in the codomain. We set

= |J Pun and @1:={ 20,

n,m=1 n>1

Note that % 1.n 1s an s V-invariant subset of P 1, and the action of sV on P L.n
commutes with the action of the symmetric group S,,, so we get an action of sV on
%1 for every n. In particular the sV -action on % induces an action of sV on .

Definition 1.3. The function #:  — N assigns to each x € % the number of blocks
in the codomain of x, that is, if x € P, ,, for some m, then #(x) = n.

Next we define a poset structure on % using the notion of “splitting”. A dyadic
map z: I°(m) — I°(n) is called a splitting (along W) if z is compatible with a
pair of dyadic coverings of the form (U, 9,). The splitting z is called nontrivial if
n > m. Colloquially then, as the name suggests, a nontrivial splitting is given by
splitting up some cubes (and then not sticking any resulting cubes together). The
inverse of a splitting (along W) is called a merging (along U).

We define an order < on % by saying that x < y if there exists a nontrivial
splitting z such that y = z o x, that is, if y is obtained from x by nontrivial splitting.
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We also denote the induced order on % by <. In particular, ?; is ordered by <.
See Figure 1 for an example of dyadic maps and splitting.
The poset P is filtered by the ¢-sublevel sets

<n
i=U 2w

1<k<n
We make the following easy observations:

Observation 1.4. The poset P, is directed (that is, any two elements have a com-
mon upper bound). Therefore, || and |%| are contractible.

Observation 1.5. The action of sV on @’1 is free. Thus, for any vertex x in ||,
the stabilizer Stab,y (x) is finite. Hence all cell stabilizers are finite and of type F.

Observation 1.6. The action of sV on 93151 is transitive, and for each n > 1 the
sublevel set |1"| is locally finite. Hence |?"| is finite modulo s V.

These observations suggest that the filtration (|9>15" Dn of |21] could be used to
show that sV is of type Fo, using Brown’s criterion.

Brown’s criterion [Brown 1987, Corollary 3.3]. Let G be a group and X a con-
tractible G-CW-complex such that the stabilizer of every cell is of type Foo. Let
{X}j>1 be a filtration of X such that each X ; is finite mod G. Suppose that the
connectivity of the pair (X i1, X;) tends to 0o as j tends to oo. Then G is of
type Feo.

It would suffice now to show that the connectivity of the pair (|27""|, |#7"|)
tends to 0o as n tends to co. This was proved for the cases s = 2, 3 [Kochloukova
et al. 2013]. However, it becomes increasingly difficult to verify for higher s. The
main difference of our approach here is that we consider a certain subcomplex
s X of |?]|. Analyzing the relative connectivity in s X turns out to be substantially
easier than in |%q|.

2. The Stein space for sV

The idea of passing to what we are calling a “Stein space” was first introduced by
Stein [1992], and in particular was used to obtain a new proof that F' is of type Fo.
This construction generalizes nicely to deal with some more complicated versions
of Thompson’s groups. For example Stein spaces were used in [Bux et al. 2012]
to prove that braided Thompson’s groups are of type Fo.. The key idea is that the
splitting establishing a relation x < y can be obtained from “elementary splittings”
that give rise to elementary relations x < x; <--- <x, <y, and these small steps are
much easier to understand locally. Heuristically, an elementary splitting amounts
to halving an s-cube at most once in any given direction. We now describe more
rigorously the construction of the Stein space.
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Definition 2.1. Call a brick C elementary if every edge of C has length at least
%. Call an elementary brick very elementary if it has volume at least % A dyadic
covering U is called (very) elementary if every brick in U has this property. Likewise,
a splitting or merging along AU is (very) elementary if U is.

For x,y € @, if y can be obtained from x by an elementary splitting, write
x < y; if moreover x # y then we write x < y. If y is obtained from x by a very
elementary splitting, write x C y; if moreover x # y, then we write x C y. Note
that the relations < and C are not transitive. In particular, the length of a chain
of very elementary splittings is bounded by the number of blocks. However, if
x1 < xp < x3 and x; < x3 then x; < x; and x; < x3, and analogously for C. It is
clear that the action of sV respects the relations <, < and C.

Clearly 7°(m) has a unique maximal elementary covering ‘€ by m - 2* bricks all
of which have volume 27°. A covering is elementary if and only if € is a refinement
of it.

The closed interval [x, y] in % is defined to be [x, y] :={w e P |x <w < y};
the open and half-open intervals are defined analogously. Call an interval [x, y] in
|P1| elementary if x <y, and very elementary if x € y. A simplex of |P1] is (very)
elementary if there is a (very) elementary interval that contains all of its vertices.

Definition 2.2. The Stein space for sV, denoted s X, is the subcomplex of ||
consisting of elementary simplices.

The following statement is the key to showing the contractibility of the Stein
space:

Lemma 2.3. Let x, y € P with x < y. There exists a unique yo € [x, y] such that
x X ypand forany x <w <y, we have w < yg. If x <y, then x < yj.

Proof. Set m :=t(x) and n :=1(y). Let X be a representative in 97‘1 for x. Let
U be the dyadic covering of I°(m) such that y is obtained from X by splitting
along U. Let € be the maximal elementary covering of I°(m). The element yq
is obtained from X by splitting along the finest common coarsening € A AU. The
desired properties follow from Observation 1.1. U

For x <y, call the yg from the lemma the elementary core of y with respect to x,
and denote it core, (y) := yo. When x is understood we omit the subscript. Observe
that if y; < y, then core(y;) < core(y»), that is, taking elementary cores respects
the poset relation. Figure 2 gives an example of an elementary core.

Lemma 2.4. For x <y withx £y, |(x, y)| is contractible.

The proof is essentially the same as the proof of the lemma in Section 4 of
[Brown 1992].
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Figure 2. A nonelementary dyadic covering, for s = 2. The thick
lines indicate the elementary core.

Proof. If w € (x, y], then core(w) € [x, y) because x £ y, and core(w) € (x, y]
because x < w. So in fact core(w) € (x, y). Also, core(w) < core(y) by the
previous discussion. The inequalities w > core(w) < core(y) provide a contraction
of |(x, y)|, by Section 1.5 of [Quillen 1978]. [l

As was done in [Brown 1992] for the Stein space of V, we can build up from
sX to |P] to show that s X is contractible.

Corollary 2.5. The Stein space s X is contractible for all s.

Proof. By Observation 1.4, |%| is contractible. We build up from sX to ||
without changing the homotopy type.

Given a closed interval [x, y], define r([x, y]) := t(y) — t(x). We attach the
contractible subcomplexes |[x, y]| for x £ y to sX in increasing order of r-value.
In particular, when we attach |[x, y]|, we attach it along |[x, y)| U |(x, y]|. But this
is the suspension of |(x, y)|, and so is contractible by the previous lemma. We
conclude that attaching |[x, y]| does not change the homotopy type, and since ||
is contractible, so is s X. U

For each n > 1 let s X=" be the full subcomplex of s X spanned by vertices x with
t(x) <n. Similarly define s X =", and let s X=" be the set of vertices x with 7 (x) =n.
Note that all of these sets are invariant under the action of s V. We will show that
the filtration (s X="), of s X satisfies the assumptions of Brown’s criterion.

Thanks to Observations 1.5 and 1.6 and to Corollary 2.5, the only remaining
feature of the filtration (s X="), of s X that we need to verify is that the connectivity
of the pair (s X="*!, s X=") tends to oo as n tends to co. This is exactly the condition
that proved difficult to verify for the filtration of |%| in [Kochloukova et al. 2013].

We will verify the relative connectivity in the next section using discrete Morse
theory. The idea is to treat ¢ as a height function on s X and inspect descending links.

3. Connectivity of the descending links and proof of the Main Theorem

We will use the following Morse-theoretic tools: Fix a vertex x in s X, say with
t(x) = n, and call n the height of x. The descending link 1k (x) of x is defined to
be the intersection of lk(x) with s X =". The fact that vertices with equal heights
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cannot share an edge means that we can obtain s X=" from s X <" by “gluing in”
each vertex at height n along its descending link. This is made rigorous by the
Morse lemma (compare Corollary 2.6 of [Bestvina and Brady 1997]):

Lemma 3.1. Let X be a simplicial complex and let f: X© — Z be such that
fx) # f(y) for adjacent vertices x and y of X. If Ik (x) is (k—1)-connected
for every vertex x € X=", then the pair (X=", X=") is k-connected, that is, the
inclusion X=" — X=" induces an isomorphism in 7;, j <k and an epimorphism
in mwg.

Fix a vertex x in s X and consider L(x) := 1k (x). As a subcomplex of |%],
L(x) is the collection of simplices given by chains y;y < --- < yg < x with y; < x.
We first consider the subcomplex Ly(x) of L(x) consisting of such chains with
Y Cx.

The complex Lo(x) naturally projects onto a matching complex.

Definition 3.2. Let I" be a graph. The matching complex M(I") of I is the simplicial
complex with a k-simplex for every collection {eg, . . ., ex} of k+1 pairwise disjoint
edges, with the face relation given by inclusion. If we regard every edge as consisting
of two oriented edges (effectively doubling each edge), we get the oriented matching
complex M°(T).

The specific graphs that we will need are generalizations of complete graphs.
For s € N, let s K, be the graph with n nodes and s edges between any two distinct
nodes. In particular 1K, is just K, the complete graph on n nodes. Color the edges
from 1 to s so that any two distinct nodes have precisely one edge of each color
between them. For a fixed labeling 1 through n of the nodes of each s K,,, we have
a projection s : sK, — K, for each s, given by sending an edge with endpoints i
and j to the unique edge of K, with endpoints i and j. Since disjoint edges map to
disjoint edges, this induces a map M(s7): M(sK,) — M(K}).

For any [ € Z, define v(l) := [ (I —2)/3].

Lemma 3.3. M(sK,) is (v(n)—1)-connected, as is M°(sK},).

Proof. 1t is well known that M(K,) is (v(n)—1)-connected; see for example
[Athanasiadis 2004; Bux et al. 2012; Bjorner et al. 1994]. For any k-simplex
o in M(K,), the fiber M(s7)~ ! (o) is the join of the fibers of the vertices of o, so
it is homotopy equivalent to a wedge of spheres of dimension k. It is clear also that
links in M(K,) are themselves matching complexes of complete graphs. Therefore
the hypotheses of Theorem 9.1 in [Quillen 1978] are satisfied, and we conclude that
M(sK}) is (v(n)—1)-connected. We also have an obvious map J° (s K,,) — M(s K},)
obtained by forgetting the orientation on the edges. The fibers of this map are
similarly spherical of the right dimension, so again using Theorem 9.1 of [Quillen
1978] we conclude that M°(sK},) is (v(n)—1)-connected. O
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Figure 3. An example of 7: VE, — M°(sK,) in the case n =
5 and s = 2. The solid arrow corresponds to a merge along a
vertical face, and the dashed arrow corresponds to a merge along a
horizontal face.

Every vertex y € Lo(x), say with #(y) = m, is obtained from x by applying a
nontrivial very elementary merging. The merging is given by a very elementary
covering AU of m blocks whose n bricks are indexed by the blocks of x. Two such
mergings define the same element y if and only if they differ by a permutation of the
blocks. Consequently, denoting by V E,, the set of very elementary coverings by n
labeled bricks up to permutation of the blocks, we get a one-to-one correspondence
between Lg(x) and V E,. We obtain a partial order V E,, from the partial order on
% via this identification.

Corollary 3.4. V E,,, and therefore Lo(x), is isomorphic to M°(sK,). Hence, both
are (v(n)—1)-connected.

Proof. Consider a nontrivial very elementary dyadic covering AU of /°(m) with n
bricks labeled 1 to n. Since AU is very elementary, each block consists of at most
two bricks. If it does consist of two bricks, then it defines an oriented edge in the
graph 5K, as follows. The two bricks are

Ik_lx(lﬂ[O, %])x[s_k and Ik_lx(lﬂ[%,l])xls_k

for some 1 < k <s. Say the first brick is labeled i and the second brick is labeled
Jj- Then the edge in sK,, defined by this block points from i to j and has color k.
See Figure 3 for an example.

This procedure defines an isomorphism of ordered sets V E, — M°(sK,). The
connectivity statement now follows from Lemma 3.3. U

The next step is to show that L(x) is highly connected by building up from
Lo(x) to L(x) along highly connected links. If s = 1, then Lo(x) = L(x) so we
may assume s > 1 in what follows.

We start by giving a combinatorial description of L (x) similar to the one given for
Lo(x) before. Every vertex in L(x) is obtained from x via a nontrivial elementary
merging. We can therefore replace “very elementary” by “elementary” in the
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discussion of V E,, above. We get that the poset E, of elementary mergings of n
labeled bricks up to permutation of blocks is isomorphic to L(x).

We now describe the Morse function that determines in which order we build up
from Lg(x) to L(x). For any U € E,, the volume of any brick in AU is at least 1/2°.
For each 0 <i < s define ¢; to be the number of bricks in U with volume 1/ 2/ Then
define c to be the lexicographically ordered function ¢ = (c;, ¢5—1, . . ., €3, ¢2). Note
that we do not include ¢ or ¢y in this tuple; this will be crucial to our arguments.
Denote by b the number of blocks of U. The height h of U is now defined to be
h = (c, b), ordered lexicographically.

Observation 3.5. Let & and % be vertices in E, with ¥ < %Y. Then ¢(¥) > c(V)
and b(X) < b(W), so in particular h(¥) < h(W) if and only if c¢(¥) = c(Y), and
h(&) > h(Y) if and only if c(¥) > c(Y).

Fix a vertex AU in E, \ VE,. The descending link of U with respect to & will
be denoted lk|,(°U). There are two types of vertices V" in lk|,(W). First, we
could have U > V" and A(U) > h(V"), which by the above observation implies that
c(U) = ¢(V'). The full subcomplex of k|, (W) spanned by such vertices will be
called the (descending) down-link. Second, we could have U <% and A (W) > h(V),
which implies that ¢(U) > ¢(V"). The full subcomplex of 1k ; (W) spanned by these
vertices will be called the (descending) up-link.

Observation 3.6. Vertices V" in the down-link and W in the up-link automatically
satisfy V" < W. Therefore lk| (W) is a join of the down-link and the up-link.

This allows us to study the up-link and the down-link separately.

Lemma 3.7. If U has a block with precisely two bricks, then the up-link of U is
contractible, and hence so is 1k, (U).

Proof. Let B be a block in U with two bricks. Note that splitting only B does not
yield a vertex with lower height. For a vertex V" of the up-link we define a vertex
Vo as follows (see Figure 4): Since V' is in the up-link, it is obtained from 9 by
splitting. Let Vg be the covering obtained from U by doing all the same splittings
as for V', except that B is not split (whether or not it was split for V). Then V¢ > U,
since V" was obtained by splitting more than just B, as observed above. It is also
clear that ¢(79) < c(W), and so V' is again in the up-link of U. Now let #p be
the maximal elementary splitting of AU that does not split B. Then for all V" in the
up-link, we have ¥y <%p. Hence we have the inequalities V' > 'y < %p, which
provide a contraction of the up-link of U, by Section 1.5 of [Quillen 1978]. ([

For [ € Z, define n(l) := | (I —2)/2°]. Note that, for a fixed s, as n — 00, n(n)
increases monotonically to co.

Lemma 3.8. If U has no block with precisely two bricks, then 1k| (W) is at least
(n(n)—2)-connected.
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%;iSé
Vo |12 |3]4]]5]6
Vo o(112(]13]4 5 6
Zp | 1 2 3 4 5|6

Figure 4. A step in building up from V E¢ to E¢ as described in
the proof of Lemma 3.7. The block B of the covering AU and its
images under the various splittings are highlighted.

Proof. Call a block in U with more than two bricks big, and a block with only one
brick small. Let k; be the number of big blocks and &, the number of small blocks.
By assumption kj, + kg is the number m of blocks in AU.

The up-link of AU is clearly at least (k,—2)-connected, since splitting a big block
in any way produces a vertex with lower height, and so each big block contributes
a nonempty join factor to the up-link. The down-link of U is isomorphic to V Ej ,
and therefore is (v(ky;)—1)-connected by Corollary 3.4. This implies that 1k{ , (U)
is (kp +v(ks)—1)-connected. Also, n is the number of bricks in AU, so n < 25k, +k;.

Since s > 1, 2° > 3, so we have

ky—2 ky—2

ko) =12 ky+ | 222 | =12k + 222 2
2%kp+-ky—2 -2
:1’2—33—23 2 2>nm) -2
We conclude that k|, (W) is at least (1(n)—2)-connected. O

Corollary 3.9. Ifs =1 then E,, and hence L(x) is (v(n)—1)-connected. If s > 1,
then E,, and hence L(x) is (n(n)—1)-connected.

Proof. The s = 1 case is already done, since then E, = VE,. Now suppose
s> 1. Then n <v,so VE, is at least (n(n)—1)-connected. Also, forW € E,\VE,,
k|, (W) is (n(n)—2)-connected by Lemmas 3.7 and 3.8. It follows from Lemma 3.1
that E,, is at least (n(n)—1)-connected. O

Proposition 3.10. For each n > 1, the pair (sX=", sX ") is n(n)-connected for
s > 1, and the pair (1X=", 1X~") is v(n)-connected.
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Proof. Let x be a vertex in s X~". By Corollary 3.9, the descending link 1k| (x) of
x in s X is at least (n(n)—1)-connected for s > 1, or (v(n)—1)-connected for s = 1.
The result now follows from Lemma 3.1. ([l

We are now in a position to apply Brown’s criterion.

Proof of Main Theorem. Consider the action of sV on sX. By Corollary 2.5,
s X is contractible, by Observation 1.5, the stabilizer of every cell is finite, and
by Observation 1.6, each sX=" is finite modulo sV. By Proposition 3.10, the
connectivity of the pairs (s X=", s X=") tends to oo as n tends to co. Hence, sV is
of type Fo, by Brown’s criterion. O
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IDEAL DECOMPOSITIONS OF A TERNARY RING
OF OPERATORS WITH PREDUAL

MASAYOSHI KANEDA

We show that any TRO (ternary ring of operators) with predual can be
decomposed into the direct sum of a two-sided ideal, a left ideal, and a right
ideal in some von Neumann algebra using an extreme point of the unit ball
of the TRO.

Recall that an operator space X is called a triple system or a ternary ring of
operators (TRO for short) if there exists a complete isometry ¢ from X into a
C*-algebra such that t(x)t(y)*t(z) € «(X) for all x, y, z € X. Our main result is
that any TRO with predual can be decomposed into the direct sum of a two-sided
ideal, a left ideal, and a right ideal in some von Neumann algebra:

Theorem. Let X be a TRO which is also a dual Banach space. Then X can be
decomposed into the direct sum of TROs X7, X1, and X,

X=X7r&X.®Xg,

so that there is a complete isometry ¢ from X into a von Neumann algebra in
which «(X1), t(XL), and (X ) are a weak*-closed two-sided, left, and right ideal,
respectively, and

LX) = uX7) Bu(X1) Be(Xp).

In the special case that the TRO is finite-dimensional, the decomposition is into a
direct sum of rectangular matrices, as first proved essentially by R. R. Smith [2000].
In the Appendix we give a short proof of that result. The following lemma is
a version of Kadison’s theorem [1951, Theorem 1] as found in [Pedersen 1979,
Proposition 1.4.8] or [Sakai 1971, Proposition 1.6.5]. Together with the idea of
embedding an off-diagonal corner into a diagonal corner developed in [Blecher and
Kaneda 2004, Section 2] (see also [Kaneda 2003, Section 2.2]), it plays a key role
in the proof of our theorem.
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Lemma (Kadison’s theorem). Let A be a C*-algebra, and let p, q be orthogonal
projections in A. Then an element x € pAq is an extreme point of Ball(p.Aq) if
and only if (p — xx*)A(g — x*x) = {0}. In this case, x is a partial isometry.

Proof of the Theorem. By [Effros et al. 2001, Theorem 2.6], we may regard X
as a weak*-closed subspace of B(XC, H) for some Hilbert spaces H and K such
that XX*X C X. We may assume that [XK] = H and [X*H] = K. We also
identify B(/C, H) with the (1, 2)-corner of B(H & K), and let 1y € B(H & K) and
I € B(H @ K) denote the orthogonal projections on H and . Then
xx=" X
L(X):= |: P ]

is the linking von Neumann algebra, 14, 1x € £(X), and X = 14 L(X)1x. Since
Ball(X) is weak*-closed in B(/C, H), there is an extreme point ¢ € Ball(X). By
Kadison’s theorem above,

(D (I —ee") X (1x — e"e) = {0},

and e is a partial isometry. Let p € X (1 — e*e)X*W* and g € X*(1y — ee*)XW*
be the identities of these two von Neumann algebras. Then by the adjoint of (1), it
follows that

(2) pXq ={0},
3) p=pee* =ee*p=pee*p and g =c*eq=qge*e=qec'eq.
Noting that pxy* € X (1 — e*e)X*W* and gx*y € X*(1y — ee*)XW*, we also get
@ pxy*=pxy*p=xy*p and ¢gx*y=¢gx*yg=x*yq forall x,yec X.
Put
qr:=e"(ly —ple(lx—q) and qr:=1lx—q—qi.
We claim that ¢; and ¢, are orthogonal projections. Indeed, (4) and the fact that
pe € X yield
g7 = (g —q)e* (13 — ple = e*e —e*pe —qe*e+qe* pe
=e'e—e"pe—ce*eq+e*peq =q
and
gt = e*(ly— ple(lc —q)e* (1 — pe(lx —q) = e* (13— pleg; (1x —q)

=e" (I —pleqi(lx —q) = e*(1yy — plee* (14 — ple(1x —q)(1x —q)

=e*ee* (13— p)(Iy—ple(lx —q)(Ix —q) = e* (13— ple(1x —q)

=41
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Noting that g;q = 0, we have q22 =q2=q;.
To see that

&) (I — p)X (1 —e*e) = {0},

let {1y} be an approximate identity of the C*-algebra X*X. Then for each x € X,
px(lx —e*e)uy = x(1xc — e*e)u,. Taking the limit ¢ — oo yields that

px(lx —e*e) =x(1x —ee)
for x € X, and hence (5) holds. Similarly,

(6) (13 —ee®) X (1x —q) = {0}
also holds.
Let x, y € X. Then
qix"y =e" (1 — p)e(lx —g)x™y

=e*(ly — plex*y(lx —q) by (4)
=e"ex*(ly —p)y(lx —q) by (4)
=x"(lg — p)y(lx —q) by the adjoint of (5)
=x"(Ix—plye*e(lx —q) by (5)
=x"ye"(ly — ple(lc —q) by (4)
=x"yq1,

and so we have
7 qx*y =x*yq1 = q1x*yq, forall x,y e X.

Put X7 := Xq1, X1 := Xq, and X := X¢,. Then these are weak*-closed TROs,
and X = X7 & X & Xg. Using (4) and (7) and noting that q;, ¢, and ¢, are
mutually disjoint, we have

XiX, =X5Xp=XiX7r =X Xp=X3Xr=X5X, ={0}
and
X*X=X:Xr® XX, ®XEXxg.

This proves that X = X % XL % XkR.
Define
X o XXV E XX
by

t(x) := (x7 +xp)e* D e*xpg,
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where x = x7 4 x + xg is the unique decomposition of x € X such that xr € Xr,
xr € X1, and xg € Xg. First note that «(X7) N¢(Xz) = {0}. Indeed, assume that
t(x7) +t(xp) =0, that is, xg1e* + xge™ = 0. Then by multiplying both sides by e
on the right and using (3) and (7), we obtain that xe*eq; + xg = 0. Multiplying
both sides by g on the right noting that g;¢q = 0 yields that xg = 0, and hence
xgie* =xqge* =0, thatis, t(x7) =t(xz) =0. Since t(X7)*1(X 1) =eX} X1 e*={0}
and «(X1)*1(X7) = eX] Xre* = {0}, we obtain

W(X7) LX) ((X7) ®uXL)) =t(X7)"1(X7) B u(Xp)*1(XL)

noting that t(X7)*1(X7) =q1 X7 X7q1 and 1(X1)*1(X) =¢X; X1q. Thus («(X) =
t(X7) % 1(Xy1) % t(Xg). To show that ¢ is a complete isometry, it suffices to show
that each of ¢|x,, t|x,, and (|x, is a complete isometry. Since e*eq| = g1,

leGr)II? = le@er) cer) || = llxgieteqix™ || = llxqix*|| = llxqi I* = llxr |1

A similar calculation works at the matrix level, which concludes that ¢x, is a
complete isometry. Similarly, (3) yields that ¢|x, is a complete isometry.

leGer) 1> = lexr)*txp) | = lgax*eexqall = llgax*ee*x(1x — g — q1) |

= llg2x*x(Ix = )l = lg2x*x(Ix — g — gDl = lgax*xqall = lIxr 1,

where we used (6) and (7) as well as the fact that goq; = 0O in the fourth equality,
and (7) together with the fact that goq; = 0 in the fifth equality. A similar calculation
works at the matrix level, which concludes that ¢|x, is a complete isometry.

By [Blecher 2001, Lemma 1.5(3)] or [Blecher and Le Merdy 2004, Theo-
rem A.2.5(3)] for example, ((X7), t(X1), and «(X ) are weak*-closed. Clearly,
t(X7) and (X ) are left ideals and ((Xy) is a right ideal in the von Neumann
algebra WW*% XX . To see that t(Xr) is a right ideal as well, it suffices to
show that («(X7)* C ¢«(X7), in which case necessarily ((X7)* = «(X7). To show
this, first note that it follows from the adjoint of (6) that

qx*=e*(ly—ple(lx—q)x*=e*(1y—ple(lx—q)x*ee* =qx*ee™ forall xeX.
Therefore, together with (7), we obtain
L(x7)* =eqix* = eq1x*ee” = ex*eqie* € Xqie* =1(X7) forall xeX. O

Definition. We call the decomposition X = X % X % X g obtained in the proof
of Theorem the ideal decomposition of the TRO X with predual with respect to an
extreme point e of Ball(X).
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Remarks. (A) The reader should distinguish ideal decompositions from Peirce
decompositions in the literature of Jordan triples. In fact, a TRO can be regarded
as a Jordan triple with the canonical symmetrization of the triple product. How-
ever, an ideal decomposition and a Peirce decomposition give totally different
decompositions.

(B) It is also possible to define ¢ : X — XX*W*% xx" by
t(x) :=xe* ®e*(xg +x7) for x € X.

(C) Simpler expressions for X7 and Xy are X7 = {x — px —xq | x € X} and
Xr = pX, which would be more helpful in understanding what is going on in the
decomposition. To see the equivalences of expressions, let x € X. Then, using
4), (5), and (2), we have

xr i =xq1 =xe" (I3 — ple(lx —q) = (1 — p)xe*e(lx — q)
=y —px(x—q)=x—px—xq.
Accordingly, it follows that

xp=xq@x=x(Igc—qg—q1) =x(lx—q) —xq1 =x(1x —q) — (x — px —xq) = px.

(D) The ideal decomposition highly depends on the extreme point chosen. Indeed,
let X be a von Neumann algebra, u € X be a unitary element, and w € X be an
isometry which is not unitary. Then the ideal decomposition with respect to u is
just X = X, while the one with respect to w is X = Xp % X

Appendix: A short proof of Smith’s result

The following theorem was proved in [Smith 2000] (also see [Effros and Ruan
2000, Lemma 6.1.7 and Corollary 6.1.8]). We observed it independently in 2000,
together with Corollary A.2. Since these results are a special case of this paper’s
Theorem, and our proof is short enough to understand the essence of the results
transparently, it seems worthwhile to present them here. The key to the shortness
of the proof is the obvious fact that if a TRO X is finite-dimensional, then so are
the C*-algebras X X* and X* X.

Theorem A.1 [Smith 2000]. If X is a finite-dimensional TRO, then there exist a
finite-dimensional C*-algebra A and an orthogonal projection p € A such that
X = pAp* completely isometrically.

Proof. Let X C B(XC, H) be a finite-dimensional TRO and {xi, ..., x,} C X be
its base. We may assume that [XK] = H and [X*H] = K. Then the C*-algebra
X X* :=span{xy* | x, y € X} is equal to the set span{x,-x;.k | 1 <i, j <n}, and the
latter is obviously a finite-dimensional vector space. Similarly, X*X := span{x*y |



302 MASAYOSHI KANEDA

x,y € X} is a finite-dimensional C*-algebra. Let £(X) be the linking C*-algebra
for X, that is,
XxX* X

LX) = [ X } (C BH®K)).

Let e, f be the identities of the C*-algebras X X* and X* X, respectively, and let

p:=|:e Oi|e£(X).

00
Then
00
1 _
"o [0 / ]
and X = pL(X)p* completely isometrically. ([

Corollary A.2. A finite-dimensional TRO is completely isometric to the direct sum
of rectangular matrices: My, 1, (C) &8 My, x,, (C).

Proof. Let X be a finite-dimensional TRO. By Theorem A.1, we may assume that
X = p (P, M,,(C)) p*, where p is an orthogonal projection in @7, M, (C).
For each 1 <i < m, let us denote by 1; the identity of M, (C) which is identified
with an element of @);_, M, (C) in the obvious way, and let p; := pl;. Then
X =L, piM,, (C) piL. By a unitary transform which is a complete isometry, we
may assume that

[; imes  (n;—[;) times [; imes  (n;—[;) times
. —— n . —— —
pi =diag{l,...,1,0,...,0} and p; =diag{0,...,0,1,...,1}
foreach 1 <i <m. O
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A STUDY OF REAL HYPERSURFACES
WITH RICCI OPERATORS
IN 2-DIMENSIONAL COMPLEX SPACE FORMS

DONG Ho LM, WOON HA SOHN AND HYUNJUNG SONG

We prove that a real hypersurface M in complex projective space P,(C)
or complex hyperbolic space H,(C), whose Ricci operator is n-parallel and
commutes with the structure tensor on the holomorphic distribution, is a
Hopf hypersurface. We also give a characterization of this hypersurface.

1. Introduction

A complex n-dimensional Kéhlerian manifold of constant holomorphic sectional
curvature c is called a complex space form, which is denoted by M, (c). As is
well known, a complete and simply connected complex space form is complex
analytically isometric to a complex projective space P,(C), a complex Euclidean
space C" or a complex hyperbolic space H, (C), according to ¢ > 0, c =0 or ¢ < 0.

In this paper we consider a real hypersurface M in a complex space form
M>(c), c #0. Then M has an almost contact metric structure (¢, g, £, ) induced
from the Kédhler metric and complex structure J on M, (c). The structure vector
field & is said to be principal if A§ = & is satisfied, where A is the shape operator
of M and o = n(A§). In this case, it is known that « is locally constant [Ki and
Suh 1990] and that M is called a Hopf hypersurface.

Takagi [1973] classified homogeneous real hypersurfaces in P,(C) into six
model spaces A, A, B, C, D and E of Hopf hypersurfaces with constant principal
curvatures. Berndt [1989] classified all homogeneous Hopf hypersurfaces in H, (C)
as four model spaces, which are said to be Ag, A1, A and B. A real hypersurface M
of type A; or Ay in P,(C) or type Ay, Aj or Ay in H, (C) is said to be of type A
for simplicity.

As a typical characterization of real hypersurfaces of type A, the following is
due to Okumura [1975] for ¢ > 0, and Montiel and Romero [1986] for ¢ < O.

Theorem A [Montiel and Romero 1986; Okumura 1975]. Let M be a real hyper-
surface of M, (c), ¢ # 0, n > 2. It satisfies A¢p —pA =0 on M if and only if M is
locally congruent to one of the model spaces of type A.

MSC2010: primary 53C40; secondary 53C15.
Keywords: real hypersurface, n-parallel Ricci operator, Hopf hypersurface.
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The Ricci operator of M will be denoted by S, and the shape operator or the
second fundamental tensor field of M by A. The holomorphic distribution 7j of a
real hypersurface M in M, (c) is defined by

(1-1) To(p) ={X € T,(M) | g(X, &), =0},

where T),(M) is the tangent space of M at p € M. The Ricci operator S is said to
be n-parallel if

(1-2) g((Vx9)Y,Z)=0
for any vector fields X, Y and Z in Tj.

Theorem B [Kimura and Maeda 1989; Suh 1990]. Let M be a real hypersurface
in a complex space form M,(c), c # 0. Then the Ricci operator of M is n-parallel
and the structure vector field & is a principal if and only if M is locally congruent
to one of the model spaces of type A or type B.

[.-B. Kim, K. H. Kim and one of the present authors [Kim et al. 2006; 2007]
studied real hypersurfaces with certain conditions related to the Ricci operator and
the structure tensor field ¢ in M, (c). As for the Ricci operator and structure tensor
field ¢, one of the present authors proved the following.

Theorem C [Sohn 2007]. Let M be a real hypersurface with n-parallel Ricci
operator in a complex space form M, (c), c # 0, n > 3. If M satisfies

(1-3) (S —¢SX,Y)=0

forany X and Y in Ty, then M is locally congruent to one of the model spaces of
type A or type B.

The purpose of this paper is to complete the results of [Sohn 2007] and charac-
terize real hypersurfaces with n-parallel Ricci operator such that the Ricci operator
and structure tensor field commute in a complex space form M, (c), c # 0, n > 2.
Namely, we prove:

Theorem. A real hypersurface in a complex space form M>(c), ¢ # 0 satisfies (1-2)
and (1-3) if and only if it is pseudo-Einstein.

The pseudo-Einstein hypersurfaces are classified by Kim and Ryan [2008] and
Ivey and Ryan [2009] and are described in detail in these papers. In view of their
results, we can state the following.

Corollary. Let M be a real hypersurface with an n-parallel Ricci operator in a
complex space form M;(c), ¢ #0. If M satisfies (1-3) then M is locally congruent to
either a Hopf hypersurface with A& = 0 or one of the model spaces of type A.
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2. Preliminaries

Let M be a real hypersurface immersed in a complex space form M,(c), and N
be a unit normal vector field of M. By V we denote the Levi-Civita connection
with respect to the Fubini—Study metric tensor g of M»(c¢). Then the Gauss and
Weingarten formulas are given respectively by

VxY =VyY +g(AX,Y)N and VyN =—AX

for any vector fields X and Y tangent to M, where g denotes the Riemannian metric
tensor of M induced from g, and A is the shape operator of M in M;(c).
For any vector field X on M we put

JX=¢X+n(X)N, JN=—¢,

where J is the almost complex structure of M,(c). Then we see that M induces an
almost contact metric structure (¢, g, &, ), that is,

P*X =X +n(X)E, ¢E=0, nE) =1,
g@X,9Y)=g(X,Y)—n(X)n¥), nX) =gX,§)

for any vector fields X and ¥ on M. Since the almost complex structure J is
parallel, we can verify from the Gauss formula that

2-1) Vyé = pAX.

Since the ambient manifold is of constant holomorphic sectional curvature c, we
have the Gauss equation

(2-2) R(X,Y)Z
= 2(8(Y. D)X —g(X. )Y +5(¢Y. 2)pX ~g($X. Z)9Y —25(¢X. V)$2)
+g(AY, Z)AX — g(AX, Z)AY

for any vector fields X, Y and Z on M, where R denotes the Riemannian curvature
tensor of M.
From (1-3) the Ricci operator S of M is expressed by

(2-3) SX = %((Zn—i— DX —3n(X)€) +mAX — A’X,

where m = trace A is the mean curvature of M, and the covariant derivative of (2-3)
is given by

(Vx$)Y = =3 (g6 AX, V)& +n(V)$AX)
L (Xm)AY +m(VxA)Y — (VxA)AY — A(VxA)Y.
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Let U be a unit vector field on M with the same direction of the vector field
—¢ Ve, and let B be the length of the vector field —¢ V& if it does not vanish. It
is not possible to define U without specifying that 8 # 0. Then it is easily seen
from (2-1) that

(2-4) A€ = at + U,

where o = n(A&). We notice here that U is orthogonal to &.
We put
Q={peM]|B(p) #0}.

Then 2 is an open subset of M.

3. n-parallel Ricci operators

In this section, we assume that €2 is not empty. Then there are scalar fields y, ¢
and ¢ and a unit vector field U and ¢ U orthogonal to & such that

3-1) AU =BE+yU+epU, ApU =¢eU + 89U
and

(3-2) m=traceA=a+y+946

in Ms(c).

We shall prove the following lemmas.

Lemma 3.1. Let M be a real hypersurface in a complex space form M;(c), ¢ # 0.
If M satisfies (1-3), then we have AU = BE +yU, ApU =8¢U and B> =a(y —9).

Proof. If we put X = £ into (2-3), we have

(3-3) SE = (% Fay +as— ,32>€ + BSU — BedU.
Putting X = U into (2-3) and taking account of (3-1) yields
(3-4) SU=,38$+<% +ay+y8—ﬁ2—82>+as¢U.

Putting X = ¢U into (2-3) and using (3-1), we obtain

(3-5) SpU = —Bet +aeU + (54—C +a8+y8—82>¢>U.
If we apply ¢ to (3-4), then we have

(3-6) (Sp — pS)U = —Bek +2aeU + (a8 — ay + B2)¢U.
From condition (1-3), we have, for all X € Ty,

(3-7) (S¢ —¢pS)X = —fg(eU + 49U, X)§
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If we substitute X = U into (3-7), then we obtain

(3-8) (S —pSU = —pes.
Comparing (3-6) and (3-8), we get ¢ =0 and 8% = a(y — 8). It follows that AU
is expressed in terms of & and U only and A¢U is given by ¢U. (]

It follows from (2-3) and (3-1) that

(3-9) SE = (% + 2a5)g + 88U,
(3-10) SU = B5E + (54—C s +a8)U,
G-11) SpU = (%+y8+a8)¢U.

Lemma 3.2. Under the assumptions of Lemma 3.1, if M has the n-parallel Ricci
operator S, then we have AU = BE +yU, ApU =0 and ,32 =ay.

Proof. Differentiating (3-10) covariantly along vector field X in 7j, we obtain

(VxS$HU = ((Z—c+y8+a8)I—S)VXU+ﬁ8¢Ax+X(ﬂ5)g+X(54_C

Taking the inner product of this equation with U and ¢U and making use of
(3-9)—(3-11) and Lemma 3.1, we obtain

+y8+a8> U.

(3-12) (@ +y)V8+8(Vy + Va) = 288U

and
6y =0.

If we differentiate this along the vector field X in Tp, then (3-12) is reduced to
(3-13) aVs+38Va =288%¢U.

Differentiating (3-11) covariantly along vector field X in Ty, we obtain

(3-14) (VyxS)U = ((%C +y8 +a8>1 _ S)VXqSU n <x(%€ +y8 +a8>)¢U.

If we take the inner product of (3-14) with ¢U and use (3-9)-(3-11), then we
have

(3-15) aVé+5sVa =0.

Comparing (3-13) and (3-15), we obtain § = 0 and > = oy from Lemma 3.1.
From this and Lemma 3.1 we conclude that AU is expressed in terms of & and U
only and A¢pU = 0. ]
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4. Proof of the main theorem

Assume that M satisfies (1-2) and (1-3). We first show that M is Hopf. If the
open set €2 is not empty, then Lemma 3.2 yields 6 = 0. Thus the Ricci operator, as
expressed in (3-9)—(3-11), has the property that &, U and ¢ U are eigenvectors and
that U and ¢U have the same eigenvalue. That is, M is pseudo-Einstein with

_Sey 3e
SX =5 X = 8(X.DE.

This contradicts a result from [Kim and Ryan 2008]. Thus we conclude that any
hypersurface satisfying (1-2) and (1-3) must be Hopf.

Since M is Hopf, condition (1-3) yields a(y — §) = 0 and that the criteria for

Proposition 2.21 in [Kim and Ryan 2008] are satisfied. Thus M is pseudo-Einstein.

Conversely, if M is pseudo-Einstein, observe that (1-2) and (1-3) must be satisfied.

O
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ON COMMENSURABILITY OF FIBRATIONS ON
A HYPERBOLIC 3-MANIFOLD

HIDETOSHI MASAI

We discuss fibered commensurability of fibrations on hyperbolic 3-mani-
folds, a notion introduced by Calegari, Sun, and Wang (Pacific J. Math.
250:2 (2011), 287-317). We construct manifolds with nonsymmetric but
commensurable fibrations on the same fibered face, and prove that if a
given manifold M does not have hidden symmetries, then M does not admit
nonsymmetric but commensurable fibrations.

It was also proved by Calegari et al that every hyperbolic fibered com-
mensurability class contains a unique minimal element. Here we provide a
detailed discussion on the proof of the theorem in the cusped case.

1. Introduction

In this paper, we are mainly interested in fibered hyperbolic 3-manifolds with the
first Betti number greater than or equal to 2. Thurston [1986] showed that such
a manifold admits infinitely many distinct fibrations (see also Section 4). It is an
interesting question to investigate the relationship between such fibrations.

Calegari, Sun, and Wang defined the notion of fibered commensurability, which
gives rise to an equivalence relation on fibrations. An automorphism on a surface
is an isotopy class of self-homeomorphisms of the surface. For any fibration on
a 3-manifold, we have the pair (F, ¢) of the fiber surface F, and the monodromy
automorphism ¢. Since the monodromy is determined up to conjugacy in the
mapping class group of F, we use the notation (F, ¢) to denote the conjugacy class.
Then commensurability of fibrations is defined as follows.

Definition 1.1 [Calegari et al. 2011]. A pair (F ¢) covers (F, ¢) if there is a finite
cover 7 : F — F and representative homeomorphisms f of q‘> and f of ¢ so that
nf fnasmapsF—>F

Definition 1.2 [Calegari et al. 2011]. Two pairs (¥, ¢1) and (F2, ¢,) are commen-

surable if there is a surface F, automorphisms ¢; and ¢,, and nonzero integers k
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and k, so that (F, ¢;) covers (Fi, ¢;) fori = 1,2 and if 5{“ = %‘2 as automor-
phisms of F.

For the remainder of the paper, we consider fibrations on hyperbolic 3-manifolds.
In this case, the monodromy of each fibration is always pseudo-Anosov (see
Definition 2.5 for the definition). The normalized entropy of a conjugacy class
(F, @) is defined as x(F)logA(¢), where x(F) is the Euler characteristic of F" and
A(¢) is the dilatation of ¢. In Section 2, we observe that the normalized entropies
of commensurable fibrations on the same hyperbolic 3-manifold agree. Then we
offer an example of a manifold such that two of its fibrations are commensurable if
and only if they share the same normalized entropy. We also give an example of a
manifold with two noncommensurable fibrations of the same normalized entropy.

In this paper, we study commensurable fibrations on a hyperbolic 3-manifold
in the context of a fibered face. A fibered face is a face of the Thurston norm ball
whose rational points correspond to fibrations of the 3-manifold and a fibered cone
is a cone over a fibered face (see Section 3 for details). Two fibrations on M are
said to be symmetric if there exists a self-homeomorphism ¢ : M — M that maps
one to the other. In [Calegari et al. 2011, Remark 3.9], Calegari, Sun, and Wang
asked if there is an example of two fibrations on the same closed manifold, which
are commensurable but have fibers distinguished by their genera. The following
theorem provides such a construction in the cusped case. In this theorem fibers are
distinguished by their Euler characteristics (see Section 4 for a proof).

Theorem 1.3. There are hyperbolic 3-manifolds with nonsymmetric but commensu-
rable fibrations whose corresponding elements in H' (M ; Z) are in the same fibered
cone.

On the other hand, if M has no hidden symmetries, then such fibrations do not
exist. Here, a (finite-volume) hyperbolic 3-manifold M = H3/ T is said to have
hidden symmetries if [CT(I") : NT(I")] > 1, where CT(I") and N T(I") are the
commensurator and normalizer of I'; see Section 4 for details.

Theorem 1.4. Suppose that M is a hyperbolic 3-manifold that does not have
hidden symmetries. Then, any pair of fibrations of M is either symmetric or
noncommensurable, but not both.

Theorems 1.3 and 1.4 are motivated by the fact that up to isotopy, there are only
finitely many commensurable fibrations on a hyperbolic 3-manifold. This fact is a
corollary of the following:

Theorem 1.5 (see also Theorem 3.1 of [Calegari et al. 2011]). Every commen-
surability class of hyperbolic fibered pairs contains a unique (orbifold) minimal
element.
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Here the notion of a fibered pair is a generalization of the notion of a pair (F, ¢),
see Section 2 for details. The proof in [Calegari et al. 2011] works for the closed
case. In Section 2 we extend it to the case where the manifolds have boundary
(Theorem 2.6). Further, as a corollary of this extension, we show examples of
manifolds such that every fibration is the minimal element in its commensurability
class (Corollary 2.8).

Commensurability classes are defined using the transitive hull of the relation in
Definition 1.2. In Section 2 we also discuss the transitivity of commensurability. We
show that if the automorphisms are pseudo-Anosov (that is to say, in the hyperbolic
case), then commensurability is transitive.

2. Preliminaries

In this section, we recall the definitions and basic facts about commensurability of
fibrations. Most of the contents in this section are discussed in [Calegari et al. 2011].
In this paper, unless otherwise stated, by a surface and a hyperbolic 3-manifold,
we mean a compact connected orientable 2-manifold possibly with boundary and
of negative Euler characteristic, and a connected, orientable, complete hyperbolic
3-manifold of finite volume respectively.

Fibered pairs. Given a homeomorphism f : F — F, the mapping torus of f is
the 3-manifold

M = F x[0,1]/((f(x).0) ~ (x,1)).

Mapping tori of conjugate automorphisms are homeomorphic, so if ¢ is a conjugacy
class of homeomorphisms we obtain a homeomorphism class of mapping tori,
which we denote by [F, ¢]. We call F the fiber and ¢ the monodromy of [F, ¢].

We will focus on fibrations of a fixed hyperbolic 3-manifold M . Each fibration
on M over the circle determines an element of H'(M;7), and if w € H' (M ;Z)
corresponds to a fibration, then there is an associated pair (F, ¢), in the sense that
[F, ¢] is homeomorphic to M . This correspondence of w and (F, ¢) is well defined
up to the conjugation of (F, ¢).

Later in this section (page 317), we discuss Theorem 3.1 of [Calegari et al. 2011]
for the case of fibered manifolds with boundary. To state the theorem it is convenient
to define a fibered pair which is a generalization of a pair of type (F, ¢). We also
enlarge our attention to orbifolds. An n-orbifold is a space that is locally modeled
on a quotient of an open ball in R” by a finite group. See [Walsh 2011] and Chapter
13 of [Thurston 1979] for more details.

Definition 2.1 [Calegari et al. 2011]. A fibered pair is a pair (M, F), where M
is a compact 3-manifold with boundary a union of tori and Klein bottles, and
is a foliation by compact surfaces. More generally, an orbifold fibered pair is a
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pair (0, 9), where O is a compact 3-orbifold, and 4 is a foliation of O by compact
2-orbifolds.

Definition 2.2 [Calegari et al. 2011]. A fibered pair (M J’) covers (M, F) if there
is a finite covering of manifolds 7 : M — M such that 7! (%) is isotopic to F.
Two fibered pairs (M 1 d?l) and (M,, F,) are (fibered) commensurable if there is
a third fibered pair (M J*) that covers both.

For a given pair (F, ¢), the mapping torus [F, ¢] has a foliation & by surface
leaves, which are homeomorphic to F and hence there is a corresponding fibered
pair ([F. ], %).

Unlike the case of commensurability in Definition 1.2, it is easy to see that com-
mensurability of fibered pairs is transitive. Suppose (M;, F;) and (M; 41, F;+1) are
commensurable for i =1, 2 and (M 12, @12) (resp. (Mz 3, @23)) is a common cover-
ing pair of (Ml, %1) and (M5, F,) (resp. (Mz, J*’z) and (M3 JP3)) Then there is a
covering p N — M, that corresponds to ) nl(Mlz) Np2m (M23) < m1(Mp),
where p!? M12 — M, and p?3 : M23 — M, are the covering maps. Then
(N, p 1(d*’z)) covers both (M1, %) and (M3, %F3). Thus we see that fibered
commensurability is a transitive relation.

We define another equivalence relation on fibered pairs so that the covering
relation will be a partial order.

Definition 2.3 [Calegari et al. 2011]. We say that two fibered pairs (M, F) and
(N, ) are covering equivalent if each covers the other. We call a covering equiv-
alence class minimal if no representative covers any element of another covering
equivalence class.

Remark 2.4 (see also Remark 2.9 of [Calegari et al. 2011]). Each covering equiva-
lence class of the fibered pair associated to (F, ¢) contains exactly one fibered pair
unless ¢ is periodic. Therefore, when we consider pseudo-Anosov automorphisms,
by abusing notation, we use the word “element” for each covering equivalent class.

Pseudo-Anosov automorphisms. The automorphisms on a compact surface are
classified into three types: periodic, reducible, and pseudo-Anosov [Thurston 1988;
Casson and Bleiler 1988]. By a result of Thurston, the (interior of the) mapping torus
[F, ¢] admits a hyperbolic metric of finite volume if and only if the automorphism
¢ is pseudo-Anosov (see [Thurston 1988], and compare [Otal 1996]).

Definition 2.5. A homeomorphism [ : F — F is a pseudo-Anosov homeomorphism
if there is a pair of transverse measured singular foliations (%°, u*) and (%%, u*) on
F and a positive real number A so that f(F*) = F*, f(u*) = Au* and f(F*) =
FS, f(u¥) = (1/A)us. We call (F*, u®) and (F*, u*) the stable and unstable
measured singular foliations associated to f.
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Figure 1. A shape of a singularity of degree 4 at the boundary.

See Figure 1 for a shape of the singularities of (%%, u%) and (F*, u*). An
automorphism ¢ is said to be pseudo-Anosov if it has a pseudo-Anosov homeo-
morphism as a representative. We call the positive real number A the dilatation of
pseudo-Anosov automorphism ¢ and denote it by A(¢).

In some cases, it is convenient to consider the restriction of automorphisms
on the interior Int(F) of F. By considering ¢ | (F), we get a pseudo-Anosov
automorphism on Int(F) and by abusing the notation we also denote it by ¢.
Note that Int(F) can be regarded as a surface with finitely many punctures, each
corresponding to a boundary component of F. Then the singularities of #° and F*
lie on Int(F) or the punctures. We denote the set of points and punctures that
correspond to the singular points of associated singular foliations by Sing(¢).

Uniqueness of the minimal element. In this subsection, we give a detailed discus-
sion of Theorem 1.5 for the case where manifolds have boundary. By passing to a
finite covering we may assume ¥ to be co-orientable and hence M fibers over the
circle; that is, M is the mapping torus [F, ¢] of some surface F and pseudo-Anosov
map ¢. Since we are dealing with commensurability classes, it suffices to discuss
the case where the foliations are co-orientable. The proof in [Calegari et al. 2011]
assumes that all singular points of the singular foliations associated to ¢ lie on the
interior of F. We prove this result for the case where some of the singular points
lie on the boundary. This corresponds to the case where Sing(¢) contains some
punctures, by restricting the automorphism on the interior Int(F) of F.

Theorem 2.6 (see also [Calegari et al. 2011]). Let (M, %) be a hyperbolic co-
orientable fibered pair and let (F, ¢) be the pair associated to (M, %). Then the
commensurability class of (M, %) contains a unique minimal (orbifold) element.
Moreover, if Int(F) N Sing(¢) = O, then the minimal element is a manifold.

Proof. First, we recall the argument in [Calegari et al. 2011], since we will need
it here. The stable and unstable singular foliations %* and %* associated to ¢
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determine a unique singular Sol metric on Int(M ). Pulling back this metric to the
universal cover 7 : M — Int(M), M becomes a simply connected singular Sol
manifold. Each fiber of M is a singular Euclidean plane. Let A be the full isometry
group of the singular Sol metric. By appealing to the local Sol metric of M, it can
be verified that each element of A preserves the foliation by the singular Euclidean
planes. Since 71(M) < A, we have the covering (]\2, @*)/nl(M) — (M, 5?)/1\.
We see that for any pair (M’, F') commensurable with (M, F) the group 1 (M)
embeds into A and hence (M', F') covers (]l~1 , 9;7) /A. Thus the theorem will be
proved if we establish the following claim.

Claim 2.7. A is discrete with respect to the compact open topology.

For the proof of this claim, the condition Sing(¢) C Int(F) is assumed in [Calegari
et al. 2011]. We prove this claim without the assumption. Note that if Sing(¢) ¢
Int(F), the singular Sol metric is not necessarily complete. Let A’ < A be the
subgroup consisting of isometries that preserve each fiber of M setwise. We first
prove that the subgroup A’ is discrete. Let S be a fiber of M and S beits completion
with respect to the singular Euclidean metric. We will extend p = 7|g : S — Int(F)
to a local isometry p : S — Int(F) U Sing(¢). Let {x;} be a Cauchy sequence in S.
Then {p(x;)} is a Cauchy sequence in Int(F) and it converges to either an interior
point of F or a point in Sing(¢). Since S consists of the equivalence classes of
Cauchy sequences in S, we can define p : [(x;)] — lim p(x;). Since p is a local
isometry, p is well defined and a local isometry. Therefore we get E := S\ S =
p~1(Sing(¢)) for the natural extension p of p. Any isometry ¢ : S — S extends
to an isometry @ : S — S and by construction we get ¢(E) = E. Suppose there is
a sequence {@;} of isometries such that ¢; — id. Since the distances between two
distinct points in E are bounded from below by a positive constant, for large enough
i, @; must fix E pointwise. Suppose that ¢ : S — S is an isometry which preserves
E pointwise. Since S is a singular Euclidean plane, we may find two points e, e;
in E which can be joined by a unique geodesic y. By appealing to the distance from
ey and e, it follows that ¢ preserves y pointwise. Note that every isometry on S
leaves the set of leaves of p~1(%*) and p~!(%*) invariant. This implies that every
leaf that intersects with y is preserved by @. Let / be one of such leaves. Since ¢
is a local isometry of Sol metric, it locally acts as a translation on S. Therefore
¢ fixes / pointwise. Since each leaf of F° or #* is dense in Int(F'), the orbit of /
under the action of the deck transformation group associated to p is also dense in S.
Hence ¢ is identity on a dense subset of S and since it is an isometry, we get ¢ = id.
Therefore for large enough i, we get ¢; = id. This proves the discreteness of A’.

The discreteness of the dynamical direction of A follows from exactly the
same argument in [Calegari et al. 2011]. We include the proof for completeness.
Note that each isometry ¢ € A extends to the metric completion M of M. We
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gl

Figure 2. The fibered link associated to a braid o € Bj.

may parametrize each fiber by real numbers ¢ in such a way that for any two
fixed flow lines a(¢),b(t) € E(t) C S(¢), the distance between () and b(t) is
Ve2x2 4 =21 p2 for some fixed x and y when |¢| is small enough. For small [¢]|
the distance between any two points in E(¢) are bounded from below by a constant
which does not depend on ¢. Therefore since v/e2/x2 + =272 is not a locally
constant function, an isometry ¢ € A close enough to the identity must fix each fiber
of the foliation by the singular Euclidean planes. Thus we see that A is discrete.
Since isometries may fix only singular points, if Int(F) N Sing(¢) = @, then A
has no fixed point in M and the last assertion holds. O

Corollary 2.8. All the fibrations of M| = S3 \6% and the magic 3-manifold M,
are minimal elements.

Proof. M; (resp. M>) is homeomorphic to the complement of the fibered link
associated to 010, le B, (resp. 0105 15, € B3), where Bj is the braid group on
3 strands (see Figure 2). It is well known that for every pseudo-Anosov element
of B3, all singularities are on the punctures. Therefore it suffices to prove that
M, and M, are minimal manifolds (not orbifolds) with respect to usual covering
relation. M7 has volume 4V}, where Vy ~ 1.01 ... is the volume of the ideal regular
tetrahedron (see for example [Gehring et al. 1998]). By [Cao and Meyerhoff 2001],
M can only cover the figure-eight knot complements or its sister (m004 or m003 in
SnapPea notation). However, SnapPy [Culler et al. 2013] can enumerate all double
covers of m003 and m004 and none of them are homeomorphic to M. Similarly,
the magic 3-manifold M, has volume ~ 5.33... and if it covers a manifold with
degree 2, then its volume is & 2.66. .., which is less than the volume of the ideal
regular octahedron (& 3.66...). By [Agol 2010], such a manifold has only one
cusp and cannot be doubly covered by M;, which has 3 cusps. Moreover, since
Vol(M,)/3 ~ 1.77--- < 2V}, again by [Cao and Meyerhoff 2001], M, cannot
cover any manifold with degree greater than 2. Now the result follows from the
last assertion of Theorem 2.6. O

Remark 2.9. For a fixed surface, there exists a pseudo-Anosov automorphism with
the smallest dilatation [Ivanov 1988]. It is interesting to compute the smallest dilata-
tion for a given surface. Hironaka [2010] and Kin and Takasawa [2011] computed
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dilatations of the monodromy of each fiber of S3\ 6% and the magic 3-manifold
respectively. It turns out that many small dilatation pseudo-Anosov automorphisms
appear as the monodromies of fibrations of those manifolds. Corollary 2.8 shows
that all such fibrations are minimal and hence their monodromies can be candidates
for the smallest dilatation pseudo-Anosov maps.

Transitivity of commensurability in Definition 1.2. In this subsection, we discuss
the subtle difference between fibered commensurability and commensurability in
the sense of Definition 1.2. Here, two pairs of type (F, ¢) are said to be fibered
commensurable if associated fibered pairs are commensurable. It is easy to see that if
two pairs (F, ¢1) and (F;, ¢,) are fibered commensurable, they are commensurable
in the sense of following definition.

Definition 2.10 [Carlson 2010]. Two pairs (1, ¢1) and (F2, ¢2) are commensu-
rable if there is a surface F, an automorphism ¢, and nonzero integers kq and k»,
so that (F, ¢) covers (F,-,qblk") fori =1,2.

In [Calegari et al. 2011], it is claimed without proof that two pairs (7, ¢1) and
(F», ¢,) are fibered commensurable if and only if they are commensurable in the
sense of Definition 1.2. Since a map cannot always be lifted even if a power of it
can be lifted, the claim is not trivial. The claim would follow from the transitivity
of commensurability in the sense of Definition 1.2, because taking powers of an
automorphism is tantamount to a covering. In this subsection, we will prove that
the transitivity of commensurability in Definition 1.2 is valid if the automorphisms
are pseudo-Anosov.

Proposition 2.11. Suppose that (F;, ¢;) and (F;11, ¢p;+1) are commensurable in
the sense of Definition 1.2 for i = 1, 2. Suppose further that ¢; are pseudo-Anosov
fori =1,2,3. Then there exlsts a pair (Fia3, ¢,) that covers (Fi, ¢;) for each
i =1,2,3 such that qbl ¢2 qb;C for some kq,ky, k3 € Z\ {0}. In particular,
commensurability in the sense of Definition 1.2 is transitive.

Proof. In Theorem 2.6 we proved that each hyperbolic fibered commensurability
class contains a unique minimal element. Let M = [Fy, ¢;]. Recall that A is
the group of isometries of the singular Sol metric on the universal cover M (see
the proof of Theorem 2.6). By considering the subgroup AT that consists of
isometries which preserve the orientation of M and the orientation of the leaf space
of M. By taking Mnj’m =M /AT, we get a unique minimal element among all
commensurable fibered pairs both orientable and co-orientable. Although there is a
natural extension of this proof in the case where M / T'T is an orbifold, such a proof
would require more terminology and could obfuscate the key ideas of the proof.
Therefore, we only present the case where M /T is a manifold. In this case we

get an associated pair (Fiin, ®min) Since M;{in is orientable and co-orientable. Each
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(Fi, ¢i) covers (Fuin, ¢rlr’;in) for some /; € Z\ {0} (i =1, 2, 3). Note that @, is not
always lifted to F;. Let H; < 71 (Fmin) be a subgroup which is the image of 7 (F;)
by the covering map for each i = 1, 2, 3. Further let d = [y (Fmin) : H; N H, N Hs],
and take Hyp3:=( {H <71 (Fnin) | [7t1 (Finin) : H] = d}. Recall that for a group G,
a subgroup H < G is called characteristic if for every isomorphism f : G — G, we
get f(H) = H. Hy,3 is a characteristic subgroup and hence every homeomorphism
on Fip lifts to the covering F,3 that corresponds to Hi3 < w1 (Fnin). Since each
¢; : F; — Fj is a lift of ¢rlr!1n it can be lifted to ¢, Fi3 —> F123 Let [ be the
least common multiple of /;’s, then by putting k; =1/ /;, we get ¢1 ¢ ¢
on Fpy3.

Remark 2.12. We do not know if the transitivity or the equivalence of fibered
commensurability and commensurability in the sense of Definition 1.2 holds for
the case where the automorphisms are periodic or reducible.

3. Thurston norm and normalized entropy

Thurston norm. Let M be a fibered hyperbolic 3-manifold. In this subsection we
recall briefly the Thurston norm on H! (M ; R) and discuss the relationship between
fibered commensurability of fibrations on a fixed manifold M and the normalized
entropy. For more details about the Thurston norm, see [Thurston 1986; Kapovich
2001; Kin and Takasawa 2011]. For any (possibly disconnected) compact surface
F=F UF,U---U Fp, let x_(F) be the sum of the absolute values of Euler
characteristics |x(F;)| of components with negative Euler characteristics. For a
given w € H' (M ;7Z) C H'(M ; R), we define |Jw|| to be

min{ X—(F) | F is an embedded orientable surface (F, 0F) C (M,dM), and
[F] e Hy(M,0M;7) is the Poincaré dual of w € HI(M;Z)}.

If F realizes the minimum, we call F a minimal representative of w. We can
extend this norm to H!(M;Q) by ||w| = ||r@||/r. It turns out that ||-|| extends
continuously to A (M ; R). Further, this |-|| turns out to be seminorm on H' (M ; R)
and the unit ball U = {w € H' (M ;R) | ||| < 1} is a compact convex polygon
[Thurston 1986]. The seminorm ||-|| is called the Thurston norm on H! (M ; R). We
need some more terminologies to explain the relationship between ||-|| and fibrations
on M. We denote

e the cone over a top-dimensional face A of the unit ball U by Ca,
e the set of integral classes on Int(Ca) by Int(Ca(Z)), and
* the set of rational classes on a top-dimensional face A by A(Q).

Theorem 3.1 [Thurston 1986]. Let M be a fibered hyperbolic 3-manifold and F
the fiber. Then there is a top-dimensional face A of U such that
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e the dual of [F] € Hy(M,0M ;7Z) belongs to Int(Ca(Z)), and

e for every primitive class w in Int(Ca (Z)), a minimal representative of w is the
fiber of a fibration on M .

We call the face A in Theorem 3.1 a fibered face and the cone over a fibered
face a fibered cone.

As a corollary, we see that if the first Betti number b;(M) > 1 and M is
fibered, then M has infinitely many distinct fibrations. We will discuss fibered
commensurability of fibrations of a hyperbolic fibered 3-manifold.

Normalized entropy. The normalized entropy is shared by commensurable fibra-
tions on a fixed hyperbolic 3-manifold.

Proposition 3.2. Suppose that [F1, ¢1] = [F», ¢,] and their interior admit hyper-
bolic metrics. If (F1, ¢1) is commensurable to (Fy, ¢,), then

X(F1)log A(¢1) = x(F2) log A(¢2).

Proof. There are pairs (F ¢,) that cover (F,,¢,) and k; € Z\ {0} fori =1, 2 such
that kl ¢>22 Then the mapping torus [F ¢k | covers [Fj, ¢;] and the degree
of thls cover is k,x(F)/X(F) Since [F1, ¢1] = [Fa, ¢2], we get k1 /x(Fy) =

ka/ X(F2). Since A(¢) = A(@),

X(F1og k(@) = £k togin) = 200 x(Fapka og 9

Putting them all together, we get x(F1) log A(¢1) = x(F2)log A(¢7). O

Each primitive integral class in Ca(Z) corresponds to a rational class in Int(A).
The normalized entropy defines a function ent : A(Q) — R. In [Fried 1982], the
function 1/ent is shown to be concave and therefore it extends to Int(A). Moreover:

Theorem 3.3 [McMullen 2000]. The function 1/ent : Int(A) — R is strictly con-
cave.

In Example 3.12 of [Calegari et al. 2011], it is remarked that some fibrations on
S3 \6% are not commensurable. In Corollary 2.8, it is proved that all fibrations on
S3 \6% are minimal elements and since each minimal element is unique, we see that
two fibrations of S \6% are either symmetric or noncommensurable. Here, we give
an alternative proof of this fact in terms of the normalized entropy. In [Hironaka
2010; McMullen 2000], the unit ball of the Thurston norm on H'(S3 \ 6%) is
computed to be a square. Further, the symmetries of the square all come from the
symmetries of the manifold (see Example 4.5 for more details about the symmetries
of 3\ 6%). Therefore the function 1/ent is invariant under the action of the
symmetries of the unit ball. Since 1/ent is strictly concave, this proves that any two
fibrations that correspond to distinct elements in H ' (M ; Z) are either symmetric
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or noncommensurable. In other words, the normalized entropy determines the
commensurability class of a fibration on S\ 6% up to symmetry.

On the other hand, in [Kin et al. 2012, §2], it is observed that for the magic
3-manifold N there are rational points on a fibered face which share the same
normalized entropy but which are not symmetric to each other. However, again by
Corollary 2.8, we also see that any two distinct fibrations of NV are either symmetric
or noncommensurable. Hence for the magic 3-manifold, the commensurability
classes of fibrations are not determined by the normalized entropies. We do not
know for what kind of hyperbolic 3-manifolds the commensurability classes of
fibrations on the same hyperbolic 3-manifold are determined by the normalized
entropy up to symmetry.

4. Commensurability of fibrations on a hyperbolic 3-manifold

In this section we prove Theorems 1.4 and 1.3.

Manifolds without hidden symmetries. We start with some definitions. A Kleinian
group is a discrete subgroup of PSL(2, C). Two Kleinian groups I'y and I'; are
said to be commensurable if 'y N T'; is a finite-index subgroup of both I'; and T';.
Let I be a Kleinian group. The commensurator C*(T") of T is

CT () ={hePSL(2,C)| I and hTh~! are commensurable},
and the normalizer N+ (I) is
Nt ({T)={hePSL(2,C)|T =hTh™'}.

Note that N *(I") < C ().

Let M be a hyperbolic 3-manifold and p : m1(M) — I' < PSL(2,C) a ho-
lonomy representation of 7{(M). By the Mostow—Prasad rigidity theorem, any
self-homeomorphism ¢ : M — M corresponds to a conjugation of I'. Therefore we
get N(I')/ T’ = Isom(M ), where Isom(M ) is the group of self-homeomorphisms
of M. If CY(I')\ NT(I') # @, each nontrivial element 7 € CT(I") \ N T(I)
is said to be a hidden symmetry. Then M is said to have no hidden symmetries
if I' has no hidden symmetries. Note that by the Mostow—Prasad rigidity theorem,
the holonomy representations of 71 (M) are related by a conjugation. Hence the
definition does not depend on the choice of a holonomy representation.

Proof of Theorem 1.4. Let (M, %) and (M, %,) be commensurable fibered pairs
that correspond to two distinct fibrations on M. By Theorem 2.6 we have a
unique minimal element (N, %) in the commensurability class. Let p: 7;(N) —
PSL(2, C) be a holonomy representation and I" := p(mr;(N)). Since (M, F;) and
(M, %,) cover (N,9), there are two corresponding coverings py, po : M — N.
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Let I'; = ppix(w1(M)) for i = 1,2. By the Mostow—Prasad rigidity theorem,
there is 4 € PSL(2, C) such that ATy A~! = I',. Further, since I', < T NATA™L,
heCT()=CT ()= NT(T;). The last equality holds since M has no hidden
symmetries. It follows that I'y = I'; and hence there exists a homeomorphism
¢ : M — M such that p;¢ = p,. Therefore w; and w, are symmetric. O

Remark 4.1. Hyperbolic 3-manifolds with hidden symmetries are “rare” among
all nonarithmetic hyperbolic 3-manifolds (see for example, [Goodman et al. 2008]).
Hence we may expect that “most” hyperbolic 3-manifolds have no hidden symme-
tries and therefore have no nonsymmetric but commensurable fibration.

Remark 4.2. As mentioned above, there are no nonsymmetric but commensurable
fibrations on S3 \ 6% and the magic 3-manifold. However, S3 \ 6% and the magic
3-manifold are arithmetic and by a result of Margulis [1991], they have lots of
hidden symmetries. Therefore even though a manifold has hidden symmetries, it
might not have any nonsymmetric but commensurable fibrations.

Nonsymmetric and commensurable fibrations. We now prove Theorem 1.3 by
constructing examples of manifolds that have nonsymmetric but commensurable
fibrations.

Lemma 4.3. Let M be a fibered hyperbolic 3-manifold. Suppose two primitive
elements w # + w, € H' (M ; Z) correspond to fibrations with the fibers and the
monodromies (Fy, ¢1) and (Fy, ¢,) respectively. We suppose further (Fy, ¢1) =
(F>, ¢2) (that is, conjugate to each other). Then, for all large enough n € N, there
exists a degree n covering space py : My, — M such that p;(w1) and p; (®;)
correspond to commensurable but nonsymmetric fibrations.

Proof. Note that by the universal coefficient theorem, we have
HY(M ;7)) =~ Hom(H;(M)/Tor, Z),

where Tor is the torsion part. This isomorphism is determined by a choice of a basis
of H(M;Z)/Tor. Let A; = ab(r1(F;))/Tor, where ab : 71 (M) — H{ (M) is the
abelianization and 71 (F;) < 71 (M) is an injection induced by the fiber bundle
structure of M associated to (Fj, ¢;) for i = 1, 2. The fiber bundle structure of M
gives the exact sequence

0 11 (F) = 1y (M) 25 7,(SYH) =7 — 0.

The map p; factors through the abelianization since ;1 (S!) = Z is abelian. Hence
we get A; = Ker(w;) = 7=, where b is the first Betti number of M. We consider
the dynamical covering p, : M, — M of degree n with respect to w; (that is, the
covering corresponding to (Fi, ¢{)). This is the covering corresponding to the
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D m-rotation

Figure 3. An involution map / on the 4-holed sphere.

surjective map
1 (M) Hy (M) 257 — 7/n7.

For sufficiently large n, there exists a € A, such that @ maps to a nonzero element
by the above surjective map. This means that each component of p,; L(F,) is not
homeomorphic to F5. O

Example 4.4. The 3-manifold S3 \ 6% and the magic manifold have symmetries
that permute cusps, and therefore they do have two distinct elements in their first
cohomology with homeomorphic fibers and conjugate monodromies.

Example 4.5. In this example we observe that M := S3 \6% has two symmetric
fibrations in the same fibered cone in H ' (M). Although this fact can be checked by
computing the symmetry group by SnapPy [Culler et al. 2013], we give a geometric
proof. The first half of the following argument is due to Eriko Hironaka, see also
[Hironaka 2010].

Let u, ¢ be the generators of Hy (M, Z) that correspond to the meridians of 6% (see
the left picture of Figure 3). Let U, T € H'(M;Z) be the dual of u, ¢ respectively.
Then U corresponds to the fibration of M with monodromy f that corresponds
to 010, I e B3. Let /i be a w-rotation, which is depicted in Figure 3. We can see
that f~1 = 0201_1 = hfh,thatis f and f~! are conjugate to each other. Then
we take the mirror image of 6%. By isotopy and above conjugacy, we see that 6% is
amphicheiral. The induced map on H'!(M ;Z) of the symmetry on M that gives
amphicheirality satisfies U — —U and T +— 7. This symmetry preserves the
fibered face A :={aU + bT | —1 <a < 1,b = 1}. By this symmetry, we see that
fibrations on the cone Cp over A of the form nU +mT and —nU +mT (n,m € 7)
are symmetric.

Proof of Theorem 1.3. Putting Lemma 4.3 and Example 4.5 together, we have a
proof. O
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MULTIPLICATIVE DIRAC STRUCTURES

CRISTIAN ORTIZ

We introduce multiplicative Dirac structures on Lie groupoids, providing a
unified framework to study both multiplicative Poisson bivectors (Poisson
groupoids) and multiplicative closed 2-forms such as symplectic groupoids.
We prove that for every source simply connected Lie groupoid G with Lie
algebroid A G, there exists a one-to-one correspondence between multiplica-
tive Dirac structures on G and Dirac structures on AG that are compatible
with both the linear and algebroid structures of AG. We explain in what
sense this extends the integration of Lie bialgebroids to Poisson groupoids
and the integration of Dirac manifolds. We explain the connection between
multiplicative Dirac structures and higher geometric structures such as ¥-
groupoids and €s{-groupoids.
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1. Introduction

Dirac structures were introduced by Courant and Weinstein [1988] as a common
generalization of Poisson bivectors, closed 2-forms and regular foliations. A Dirac
structure on a smooth manifold M consists of a vector subbundle L C TM :=
TM @ T*M that is maximal isotropic with respect to the nondegenerate symmetric
pairing on TM,

(X, ), (Y, B)) =a(Y) + B(X),

and that satisfies the integrability condition
[C(L), MO € I'(L),
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with respect to the Courant bracket [-, - : T'(TM) x '(TM) — I'(TM),
[(X, ), (¥, )] = (X, Y], £xB —iyda).

The integrability in the sense of Courant unifies different integrability conditions,
including closed 2-forms, Poisson bivectors and regular foliations (see [Courant
1990b; Courant and Weinstein 1988]). More precisely, a 2-form @ on a smooth
manifold M induces a bundle map w* : TM — T*M, X > w (X, -) whose graph
L, ={(X,w*(X) | X € TM)} is a Lagrangian subbundle of TM. In this case, the
Courant integrability of L,, is equivalent to w being a closed 2-form. Similarly,
any bivector 7 on M defines a bundle map 7° : T*M — TM, o — 7(«, - ) whose
graph L, = {((m¥(@), o)} is a Lagrangian subbundle of TM. One checks that L,
satisfies the Courant integrability condition if and only if 7 is a Poisson bivector.
Also, if F € TM is a regular subbundle we denote by F° C T*M its annihilator.
Then the Lagrangian subbundle F' @ F° C TM is integrable in the sense of Courant
if and only if F € TM is involutive with respect to the Lie bracket of vector fields.
The main objective of this paper is to study Dirac structures defined on Lie
groupoids, satisfying a suitable compatibility condition with the groupoid multipli-
cation. Our study is motivated by a variety of geometrical structures compatible
with group or groupoid structures, including:
(i) Poisson—Lie groups: A Poisson-Lie group is a Lie group G with a Poisson
structure 7 that is compatible in the sense that the multiplication mapm : G x G — G
is a Poisson map. Equivalently, the Poisson bivector 7 is multiplicative, that is,

Tlgh = (lg)*nh + (rh)*ng,

for every g, h € G. Here I, and r;, denote the left and right multiplication by g
and &, respectively. Poisson—Lie groups arise as semiclassical limit of quantum
groups, and they are infinitesimally described by Lie bialgebras. See for example,
[Drinfel’d 1983].

(ii) Symplectic groupoids: A symplectic groupoid is a Lie groupoid G with a
symplectic structure w that is compatible with the groupoid multiplication in the
sense that the graph

Graph(m) € G x G x G

is a Lagrangian submanifold with respect to the symplectic structure w & w © w.
This compatibility condition is equivalent to saying that w is multiplicative, that is,
m*w = priw+ prio,

where pri, pry : G2y — G are the canonical projections and G2y € G x G is
the set of composable groupoid pairs. Symplectic groupoids arise in the context
of quantization of Poisson manifolds [Weinstein 1987; Weinstein and Xu 1991],
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connecting Poisson geometry to noncommutative geometry. In [Cattaneo and Felder
2001], symplectic groupoids appeared as phase spaces of certain sigma models.
The infinitesimal description of symplectic groupoids is given by Poisson structures,
see for example, [Weinstein 1987; Coste et al. 1987].

(ii1) Poisson groupoids: These objects were introduced by A. Weinstein [1988]
unifying Poisson—Lie groups and symplectic groupoids. A Poisson groupoid is a
Lie groupoid G equipped with a Poisson structure 7 that is compatible with the
groupoid multiplication in the sense that

Graph(m) € G x G x G

is a coisotropic submanifold. These structures are related to the geometry of the
classical dynamical Yang-Baxter equation, see for instance [Etingof and Varchenko
1998]. At the infinitesimal level, Poisson groupoids are described by Lie bialgebroids
[Mackenzie and Xu 1994].

(iv) Presymplectic groupoids: Lie groupoids equipped with a multiplicative closed
2-form were studied in [Bursztyn et al. 2004]. A presymplectic groupoid is a Lie
groupoid G with a multiplicative closed 2-form w satisfying suitable nondegeneracy
conditions. These objects arise in connection with equivariant cohomology and gen-
eralized moment maps [Bursztyn and Crainic 2009]. The infinitesimal description
of presymplectic groupoids is given by Dirac structures, extending the infinitesimal
description of symplectic groupoids. More generally, Lie groupoids endowed with
arbitrary multiplicative closed 2-forms are infinitesimally described by bundle maps
0 :AG — T*M called IM-2-forms. Here AG denotes the Lie algebroid of G, and
T*M is the cotangent bundle of the base of G.

The first goal of this work is to find a suitable definition of multiplicative Dirac
structure that includes both multiplicative Poisson bivectors and multiplicative
closed 2-forms, and hence encompasses all examples above. This is obtained by
observing that given a Lie groupoid G over M with Lie algebroid AG, the tangent
bundle 7'G and the cotangent bundle 7*G inherit natural Lie groupoid structures
over TM and A*G, respectively. One observes that a bivector ¢ is multiplicative
if and only if the bundle map ng : T*G — TG is a groupoid morphism [Mackenzie
and Xu 1994]. Similarly, a 2-form w¢ is multiplicative if and only if the bundle
map a)ﬂG : TG — T*G is a morphism of Lie groupoids. It turns out that the direct
sum vector bundle 7G & T*G is a Lie groupoid over TM & A*G, and graphs of
both multiplicative Poisson bivectors and multiplicative closed 2-forms define Lie
subgroupoids of TG & T*G. We say that a Dirac structure L on a Lie groupoid G
is multiplicative if L € TG & T*G is a Lie subgroupoid. A Lie groupoid G
equipped with a multiplicative Dirac structure is referred to as a Dirac groupoid.
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Our main purpose is to describe multiplicative Dirac structures infinitesimally,
that is, in terms of Lie algebroid data. This work can be considered as a first step
toward such a description. The main result of the present work says that for every
source simply connected Lie groupoid G with Lie algebroid AG, multiplicative
Dirac structures on G correspond to Dirac structures on AG suitably compatible
with both the linear and Lie algebroid structures on AG. In the particular case of
multiplicative Poisson bivectors and multiplicative 2-forms, we explain how this is
equivalent to the known infinitesimal descriptions carried out in [Mackenzie and
Xu 2000] and [Bursztyn et al. 2004], respectively. Along the way, we develop
techniques that can treat all multiplicative structures above in a unified manner,
often simplifying existing results and proofs.

The present paper is organized as follows. In Section 2 we recall the definition
of tangent and cotangent structures including tangent and cotangent groupoids and
their algebroids, that is, tangent and cotangent algebroids. We also give an intrinsic
construction of the tangent lift of a Dirac structure, providing an alternative proof
of the results shown in [Courant 1990a]. In Section 3 we define the main objects
of our study, multiplicative Dirac structures. We discuss a variety of examples
arising in nature, including foliated groupoids, Dirac Lie groups, tangent lifts of
multiplicative Dirac structures, symmetries of multiplicative Dirac structures (for
example, reduction of Poisson groupoids), B-field transformations of multiplicative
Dirac structures and generalized complex groupoids. In Section 4 we introduce the
notion of Dirac algebroid and also several examples are discussed, including foliated
algebroids, Dirac Lie algebras, tangent lifts of Dirac algebroids, symmetries of Dirac
algebroids (for example, reduction of Lie bialgebroids), B-field transformations of
Dirac algebroids and generalized complex algebroids. In Section 5 we explain how
the multiplicativity of a Dirac structure is reflected at the Lie algebroid level, proving
the main result of this work, which says that if G is a source simply connected Lie
groupoid with Lie algebroid AG, then there is a one-to-one correspondence between
Dirac groupoid structures on G and Dirac algebroid structures on AG. Along the
way, we explain the relation between multiplicative Dirac structures and higher
structures such as ‘€s-groupoids and £«-groupoids. We also relate the examples
of Section 3 with the examples of Section 4, in the spirit of the correspondence
established by the main result of the paper. In Section 6, we discuss conclusions
and work in progress.

1A. Notation and conventions. For a Lie groupoid G over M we denote by s, 1 :
G — M the source and target maps, respectively. The multiplication map is
denoted by m : G2y — G, where Gy = {(g,h) € G x G | s(g) = t(h)} is the
set of composable pairs. The Lie algebroid of G is defined by AG := Ker(T's)| y,
with Lie bracket given by identifying sections of AG with right-invariant vector
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fields on G and anchor map psg := Tt|ag : AG — TM. Given a Lie groupoid
morphism W : G; — G, the corresponding Lie algebroid morphism is denoted
by A(V) : AG; — AG,. Arbitrary Lie algebroids are denoted by A — M with
Lie bracket [ -, - ]4 and anchor map p4. Also, given a smooth manifold M, the
tangent bundle is denoted by pys : TM — M and the cotangent bundle is denoted
by cy : T*M — M.

2. Tangent and cotangent structures

2A. Tangent and cotangent groupoids. Let G be a Lie groupoid over M with
Lie algebroid AG. The tangent bundle 7'G has a natural Lie groupoid structure
over TM. This structure is obtained by applying the tangent functor to each of the
structure maps defining G (source, target, multiplication, inversion and identity
section). We refer to TG with this groupoid structure over TM as the tangent
groupoid of G. The set of composable pairs of TG is (T G) @) = T(G(2)), and for
(g, h) € G2 and a tangent groupoid pair (Xg, ¥;,) € (T G)(2) the multiplication
map on TG is

Xg'Yh = Tm(Xg, Yh).

Now consider the cotangent bundle 7*G. It was shown in [Coste et al. 1987]
that 7*G is a Lie groupoid over A*G. The source and target maps are defined by

S(agu =og(Tly(u—Tr(u))) and 7(By)v = Bg(Tre(v)),
where ag € T;G, u € Ayg)G and By € Ty G, v € A;(g)G. The multiplication on
T*G is defined by
(g0 Br)(XgoYy) =ag(Xg)+ Br(Yn)

for (Xg, Yn) € Tig.n)G(2).
We refer to T*G with the groupoid structure over A*G as the cotangent groupoid
of G.

2B. Tangent and cotangent algebroids. Let g4 : A — M be a vector bundle
over M. The tangent bundle T'A has a natural structure of a double vector bundle
[Pradines 1974], given by the diagram below.

Tqa
TA —TM

ey pa pu

qA
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Assume now that g4 : A — M has a Lie algebroid structure with anchor map
pa:A— TM and Lie bracket [ -, -] on ')/ (A).

As explained in [Mackenzie 2005], there is a canonical Lie algebroid structure on
the vector bundle T'g4 : TA — TM. Recall that there exists a canonical involution
Jy : TTM — TTM, which is a morphism of double vector bundles. In a local
coordinates system (x’, X', 8x%, 8x) on TTM this map is given by

T (e, 0, 8xt, 8x1)) = (xF, 8xt, &%, 8.

Notice that the map Jj, yields a vector bundle isomorphism as below.

Iu

TTM TTM
) Tpm prM
Id
™ ————— 1M

Now we can apply the tangent functor to the anchor map p4 : A — TM, yielding a
bundle map Tp4 : TA — TTM, where TTM is equipped with bundle projection
Tpy : TTM — TM. Therefore, composing 7p4 with the canonical involution Jy,
we obtain the bundle map pr4 : TA — TTM, defined by

pra = JpyoTpa,

which is a vector bundle morphism from TA — T TM, where the target bundle is
the one corresponding to the usual bundle projection pry : TTM — TM. The map
pra : TA — TTM, as above, defines the tangent anchor map. In order to define the
tangent Lie bracket, we observe that every section u € I'j;(A) induces two types
of sections of T'g4 : TA — TM. The first type corresponds to the linear section
Tu:TM — TA, which is given by applying the tangent functor to the section
u: M — A. The second type of section is the core section i : TM — TA, which is
defined by

a(X) = TO0*)(X) +4 u(pu (X)),

where 04 : M — A denotes the zero section, and u(py (X)) =d /dt (tu(pp(X)))]i—o-
As observed in [Mackenzie and Xu 1994], sections of the form Tu and i generate the
module of sections "7y (T'A). Therefore, the tangent Lie bracket is determined by

[Tu, Tv]l=T[u,v], [Tu,d]=I[uw v, [4 0]=0,

and we extend to other sections by requiring the Leibniz rule with respect to the
tangent anchor pr4. This defines the natural Lie algebroid structure on Tg4 : TA —
™.
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Example 2.1. Assume that A = g is a Lie algebra, that is, a Lie algebroid over a
point. In this case, the tangent Lie algebra structure on Tg = g x g is given by the
semidirect product Lie algebra determined by the adjoint representation of g on
itself.

Following [Mackenzie 2005], the cotangent bundle of a Lie algebroid inherits
a Lie algebroid structure. For that, let us explain the vector bundle structure
T*A — A*. If (x', u®) are local coordinates on A, we induce a local coordinates
system (x', u®, pi, Aq) on T* A, where (p;) determines a cotangent element in M
and (A,) € A} is a cotangent element with respect to the tangent direction to the
fibers of A. Now the bundle projection r : T*A — A* is described locally by
r(xt, u®, pi» ha) = (x', A4). These vector bundle structures define a commutative
diagram

3) ca qax

This endows 7*A with a double vector bundle structure. Suppose that g4 : A —> M
carries a Lie algebroid structure. Then we can consider the dual bundle A* endowed
with the linear Poisson structure induced by A. The cotangent bundle 7*A* — A*
has the Lie algebroid structure determined by the linear Poisson bivector on A*.
There exists a Legendre type map R : T*A* — T*A that is an antisymplectomor-
phism with respect to the canonical symplectic structures, and it is locally defined
by R(x', &,, pi,u) = (x%, u®, — pi, &,). For an intrinsic definition see [Mackenzie
and Xu 1994; Tulczyjew 1977].

Definition 2.2. The cotangent algebroid of A is the vector bundle T*A — A*
equipped with the unique Lie algebroid structure that makes the Legendre type
transform R : T*(A*) — T*A into an isomorphism of Lie algebroids.

Example 2.3. Suppose that A = g is a Lie algebra, that is, a Lie algebroid over a
point. Then, the cotangent algebroid T*g = g x g* — g* is given by the transfor-
mation Lie algebroid with respect to the coadjoint representation of g on its dual
vector space g*.

Finally, recall also that the Tulczyjew map ©p : TT*M — T*TM is the isomor-
phism which, in a local coordinates system (x’, p;, X, p;), is given by
Ou (', pi X', pi) = (', &7, pi. po).

See [Mackenzie and Xu 1994; Tulczyjew 1977] for an intrinsic definition. Con-
sider now a Lie groupoid G over M with Lie algebroid AG = ker T's|y. There
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exists a natural injective bundle map
4) irc: AG = TG.

The canonical involution Jg : TTG — T TG restricts to an isomorphism of Lie
algebroids jg : T(AG) — A(T G). More precisely, there exists a commutative
diagram

T(AG) A(TG)
®)) T(iag) iA(TG)
JG
TTG TTG

In particular, the Lie algebroid A(7 G) of the tangent groupoid is canonically
isomorphic to the tangent Lie algebroid T (AG) of AG. Similarly, the Lie algebroid
of the cotangent groupoid 7* G is isomorphic to the cotangent Lie algebroid T*(AG).
For that, notice that the natural pairing T*G®T G — R defines a groupoid morphism,
and the application of the Lie functor yields a symmetric pairing (-, - )) : A(T*G) P
A(T G) — R, which is nondegenerate. See for example, [Mackenzie and Xu 1994;
2000]. In particular, we obtain an isomorphism K¢ : A(T*G) — A(T G)*, where
the target dual is with respect to the fibration A(T G) Alpe), AG. Now we define a
Lie algebroid isomorphism

(6) jc t A(T*G) - T*(AG),

determined by the composition jé; = ji o Kg, where j& : A(TG)* — T*(AG) is
the bundle map dual to the isomorphism jg : T(AG) - A(TG). As jg: T(AG) —
A(T G) is a suitable restriction of the canonical involution J; : TTG — TTG, the
isomorphism j; is related to the Tulczyjew map O : TT*G — T*TG, via

J6 = (Tiag) 0 Og oiar=c).

2C. Tangent lift of a Dirac structure. The tangent lift of Dirac structures was
originally studied by T. Courant [1990a], who described tangent Dirac structures
locally. I. Vaisman [2005] gives an intrinsic construction of tangent Dirac structures,
where the tangent lift of a Dirac structure is described via the sheaf of local sections
defining a Dirac subbundle of TTM & T*TM. Here, we provide an alternative
description of the tangent lift of a Dirac structure relied on the tangent lift of Lie
algebroid structures described in the previous section.

In order to fix our notation, we begin by summarizing some of the main properties
of tangent lifts of vector fields and differential forms, see [Grabowski and Urbariski
1997; Yano and Ishihara 1973]. Let f € C°°(M) be a smooth function. Then we
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have a pair of smooth functions on 7M defined by

f'=fopu, f=df.

We refer to f¥ and f7 as the vertical and tangent lifts of f. One can see easily
that the algebra of functions C*°(TM) is generated by functions of the form f*
and fT. Now, given a vector field X on M we define the vertical lift of X as the
vector field X on TM that acts on vertical and tangent lifts of functions as

X'(f=0, X'(f1)=(Xf)".

The tangent lift of X is the vector field X7 on TM that acts on vertical and
tangent lifts of functions in the following manner:

xXT(Hy=xpns, xTH=xn'.

It is easy to see that vertical and tangent lifts of vector fields generate the space of
all vector fields on 7M. Now let us consider a 1-form « on a smooth manifold M.
We define the vertical lift of « as the 1-form o” on TM, which is determined by its
value at vertical and tangent lifts of vector fields,

a'(X") =0, a’(X")=(a(X))".
The tangent lift of « is the 1-form a” on TM defined by
a’ (X") = (@(X)’, o' (XT) = (@)

It is important to emphasize that vertical and tangent lifts of vector fields (resp.

of 1-forms) are sections of the usual vector bundle structure 7 (TM) L M

(resp. sections of T*(TM) IMTM ), and they do not define sections of the tangent
prolongation vector bundle 7 (TM) 2 Tm (resp. of the tangent prolongation
T(T*M) Tem, TM). However, there exists a canonical relation between vector
fields (resp. 1-forms) on TM and sections of the tangent prolongation vector bundle
T(TM) — TM (resp. T(T*M) — TM). Given a vector field X and a 1-form
o on M, we consider the linear sections 7 X, Ta and the core sections X ,a
of the corresponding tangent prolongation vector bundles. It follows from the

definition that
(7 In(TX)=X" JyuX)=X".
(8) Ou(Ta)=al, Oy@) =a.

It turns out that many geometric properties of the direct sum vector bundle 7 (TM) &
T*(TM) can be understood in terms of tangent geometric properties of 7 (TM) &
T (T*M), using the canonical identification

Ju®Oy T(TMYDT(T*M) —> T(TM) D T*(TM).
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Now consider a Dirac structure Ly, on M. Equivalently, we may think of Lj; as
a Lie algebroid over M with Lie bracket given by the Courant bracket on sections
of Ly, and the anchor map py, is the natural projection from Ly, CTM & T*M
onto TM. According to a construction of K. Mackenzie and P. Xu [1994], we can
consider the tangent prolongation Lie algebroid TLy; — TM, with anchor map

prm = JuoTppy,

and Lie bracket defined by

lai, a2lre,, =0, [Tai, alrr,, =lar, a2l, [Tai, Taxlre, = Tlar, azl,

where ay, a; are sections of Lj; — M. We denote by Ly, the image of TL ; under
the natural bundle map Jyy @ Oy : TTM STT*M - TTM & T*TM.

Proposition 2.4. The subbundle L1y C TTM ® T*TM is isotropic with respect
to the nondegenerate symmetric pairing (-, - )7y defined on TTM & T*TM.

Proof. Let (X, ), (Y, B) be sections of L. Then, the tangent lifts (X7, ) and
(YT, BT) define sections of L7y. Notice that

(xT,ah), (", 81 = BN + @)’ = (X, a), (¥, pH)T =0.
This implies that L, is isotropic. ([

The tangent Lie algebroid 7L — TM induces a unique Lie algebroid structure
on L7y — TM characterized by the property that Jy; @ Oy : TLyy — L7y is a
Lie algebroid isomorphism. The space of sections I"(L7y,) is generated by sections
of the form a” := (Jyy @ Opy)(Ta) and av := (Jy ® Op)a, where a is a section
of Ly — M. In particular the induced Lie bracket on sections of Ly, is completely
determined by identities

la},a31=0, [af.a}]=la1.a]’, laf.a;]=la1,a]",
and the Leibniz rule with respect to the induced anchor map prrry : Ly — TTM.

Proposition 2.5. The induced Lie bracket on sections I"(Ltyy) is a restriction of
the Courant bracket [[ -, - Ity on sections of TTM & T*TM.

Proof. Due to the identities (7) and (8), we only need to check that the Courant
bracket on sections of Lry, naturally induced by Jy; @ ©y,, satisfies the bracket
identities that determine the induced Lie bracket on I'(L7)). One observes that
vertical and tangent lifts are compatible with Lie derivatives in the sense that

(1) Lxva’ =0,
(2) Exra’ = (Lxa)’,
(3) Exral = (Exa)T,
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and we conclude that
() [X'@a’, Y& B =0,
Q) X", Y @B =X, Y]"® (LxB —iyda)’,
Q) [XT@a” YT @p =X, Y] & (ExB—iyda)’.
Thus the Lie bracket on 'ty (L7p) induced by the tangent Lie bracket on
7y (TLyy) coincides with the Courant bracket. O

We have shown the following:

Proposition 2.6. Let M be a smooth manifold. There exists a natural map

Dir(M) — Dir(TM)

Ly — Lty,

where Ly := (Jyy ®@ O ) (TL ).

The Dirac structure Ly, € Dir(TM) given by the proposition above is referred
to as the tangent Dirac structure induced by Lj; € Dir(M). It is straightforward
to check that this construction unifies the tangent lift of both closed 2-forms and
Poisson bivectors. Additionally, the presymplectic foliation of Ly, corresponds to
taking the tangent bundle of each leaf endowed with the tangent lift of the leafwise
presymplectic forms defined by L. See also [Boumaiza and Zaalani 2009] for
a general construction of tangent lifts of Dirac structures on arbitrary Courant
algebroids.

3. Multiplicative Dirac structures

This section introduces the main objects of study of this work, that is, Lie groupoids
equipped with Dirac structures compatible with the groupoid multiplication, includ-
ing both multiplicative Poisson and closed 2-forms as particular cases.

3A. Definition and main examples. Let G be a Lie groupoid over M, with Lie
algebroid AG. Consider the direct sum Lie groupoid TG = TG & T*G with base
manifold TM & A*G.

Definition 3.1. Let G be a Lie groupoid over M. A Dirac structure L on G is
said to be multiplicative if L C TG ® T*G is a subgroupoid over some subbundle
ECTM @ A*G.

We refer to a pair (G, L), made up of a Lie groupoid G and a multiplicative
Dirac structure L on G, as a Dirac groupoid. We use the notation Dirp;(G) to
indicate the set consisting of all multiplicative Dirac structures on G.

It follows from the multiplicativity of Lg that E C TM @ A*G is a vector
subbundle. In particular, a multiplicative Dirac structure L on a Lie groupoid G
defines a V'%-subgroupoid Ls C TG.
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Example 3.2. Let wg be a closed multiplicative 2-form on a Lie groupoid G.
The multiplicativity property of w¢g is equivalent to saying that the bundle map
wé : TG — T*G is a morphism of Lie groupoids. Hence, the corresponding Dirac
structure L, = Graph(wg) € TG is a multiplicative Dirac structure. In this case
we have a groupoid L,,; = E, where E C TM & A*G is the subbundle given by
the graph of the bundle map —o’ determined by the IM-2-form (see [Bursztyn et al.
2004]) o associated to wg.

Example 3.3. Let (G, ) be a Poisson groupoid. The multiplicativity of ¢ is
equivalent to saying that ng :T*G — T G is amorphism of Lie groupoids. Therefore,
the associated Dirac structure L, = Graph(7g) C TG defines a multiplicative
Dirac structure. In this case we have a groupoid L,, = E, where E C TM & A*G
is the subbundle given by the graph of dual anchor map pa+g : A*G — TM.

The examples discussed previously show that Dirac groupoids lead to a natural
generalization of Poisson groupoids and presymplectic groupoids. Our main aim is
to describe Dirac groupoids infinitesimally, establishing in particular, a connection
between such an infinitesimal description and Lie bialgebroids and IM-2-forms.

3B. More examples of multiplicative Dirac structures. In addition to multiplica-
tive closed 2-forms and multiplicative Poisson bivectors, there are several interesting
multiplicative Dirac structures, which will be discussed throughout this subsection.

3B1. Foliated groupoids. A regular distribution Fg C T G is called multiplicative
if it defines a Lie subgroupoid of the tangent groupoid T G. A foliated groupoid is
a pair (G, Fg), where G is a Lie groupoid and Fg is an involutive multiplicative
regular distribution. In this case, the Dirac structure Fg @ Fg C TG is easily seen
to be a multiplicative Dirac structure on G. The foliation tangent to an involutive
multiplicative distribution is called a multiplicative foliation. Multiplicative foli-
ations that are simultaneously transversal to the s-fibration and to the ¢-fibration
were studied in [Tang 2006], providing interesting examples of noncommutative
Poisson algebras. Also, multiplicative foliations arise in the context of geometric
quantization of symplectic groupoids, namely, as polarizations compatible with
a symplectic groupoid structure (see [Hawkins 2008]). In addition, the notion of
multiplicative foliation has appeared in connection with exterior differential systems.
For more details see [Crainic et al. 2012] and the references therein.

3B2. Dirac Lie groups. Dirac Lie groups, that is, Lie groups equipped with multi-
plicative Dirac structures, were first studied by the author in [Ortiz 2008], providing
a generalization of Poisson Lie groups within the category of Lie groups. In that
work, it is shown that, modulo regularity issues, Dirac Lie groups are given by the
pull-back (in the sense of Dirac structures) of Poisson Lie groups via a surjective
submersion which is also a Lie group morphism. Notice that whenever a Lie
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groupoid G over M is equipped with a multiplicative Dirac structure, then for every
x € M, the isotropy Lie group G, :=s~!(x)Nz~!(x) inherits a Dirac structure L,
making the pair (G, L¢,) into a Dirac Lie group.

We emphasize that different notions of Dirac Lie groups exist in the literature. For
instance, Li-Bland and Meinrenken [2011] have proposed a notion of multiplicativity
that includes interesting examples of twisted Dirac structures on Lie groups such as
the Cartan—Dirac structure on a compact Lie group.

3B3. Tangent lift of a multiplicative Dirac structure. In [Grabowski and Urbarnski
1995] it was proved that whenever a Lie group G carries a multiplicative Poisson
bivector 7, then the tangent Lie group 7T G equipped with the tangent Poisson
structure ¢ becomes a Poisson Lie group. It is easy to extend the multiplicative
Poisson case to abstract multiplicative Dirac structures on Lie groupoids. Assume
that G is a Lie groupoid over M and consider the tangent groupoid 7G over TM
explained in Section 2A. Then, the tangent Dirac structure Ly CTTGHT*TG
induced by a multiplicative Dirac structure L C TG @& T*G is also a multiplicative
Dirac structure. Indeed, first observe that the bundle map Jg : TTG — TTG
is a groupoid isomorphism over Jy; : TTM — TTM. Similarly, the bundle map
O¢ :TT*G — T*TG is a groupoid isomorphism over the canonical identification
I :T(A*G) — (T(AG))*. Since L is a Lie subgroupoid of TG & T*G, then the
tangent functor yields a Lie subgroupoid TLg of TTG @ TT*G. Due to the fact
that L7 is the image of TL¢ via the groupoid isomorphism J; @ Og, we see
that L inherits a natural structure of Lie subgroupoid of 77T G & T*T G. Hence
we conclude that L1 defines a multiplicative Dirac structure on 7'G.

3B4. Symmetries of multiplicative Dirac structures. Let L be a multiplicative
Dirac structure on a Lie groupoid G = M, and let H be a Lie group acting on G
by groupoid automorphisms. Assume that the H-action is free and proper and
that the H-orbits coincide with the characteristic leaves of L. In this case the
quotient space G/ H inherits the structure of a Lie groupoid over M /H. Moreover,
since G/H is the space of characteristic leaves of L, we conclude that there exists
a Poisson structure mq on G/H, making the quotient map G — G/H into both
a backward and forward Dirac map. This fact together with the multiplicativity
of L imply that w4 is a multiplicative Poisson bivector. In other words, the
quotient space G/H is a Poisson groupoid. In the case where L is the graph
of a multiplicative Poisson bivector and the action is Hamiltonian in the sense of
Fernandes and Iglesias [> 2013], this recovers some of the results about reduction
of Poisson groupoids carried out by those authors.

3BS. Multiplicative B-field transformations. Let L C TM be a Lagrangian sub-
bundle. Given a 2-form B € Q2?(M) one can construct the Lagrangian subbundle
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73(L) € TM defined by
(L) ={X@Da+ixB| XPaell.

A straightforward computation shows that 75 (L) defines a Dirac structure on M
if and only if B is a closed 2-form. See for instance [Bursztyn 2005; Gualtieri
2003]. In this case, we say that the Dirac structure tg(L) is obtained out of L by a
B-field transformation.

Assume now that L¢ is a multiplicative Dirac structure on a Lie groupoid G.
Given a multiplicative closed 2-form Bg on G, one can consider the bundle map
13, : 1G—=> TG, XPar— XPa+ix(Bg). It follows from the multiplicativity of Bg
that tp, is a Lie groupoid isomorphism. As a result, the Dirac structure 7, (L)
on G is multiplicative. Our interest in B-field transformations of multiplicative
Dirac structures is motivated by the work carried out in [Bursztyn 2005; Bursztyn
and Radko 2003], where the authors study the connection between certain B-field
transformations of symplectic and Poisson groupoids and the notion of Morita
equivalence of Poisson manifolds.

3B6. Generalized complex groupoids. Generalized complex structures were intro-
duced in [Hitchin 2003] and further developed in [Gualtieri 2003]. Given a smooth
manifold M, one can consider the complexified vector bundle TcM :=TM Q C
endowed with the complex Courant bracket and the complex pairing (-, -). A
generalized complex structure on M is a complex Dirac structure L € T¢M such
that L N L = {0}, where L denotes the conjugate of L. Complexified versions of
multiplicative Dirac structures give rise to generalized complex groupoids. More
concretely, let G be a Lie groupoid equipped with a generalized complex struc-
ture Lg. We say that (G, Lg) is a generalized complex groupoid if Lg C TecG
is a Lie subgroupoid. Generalized complex groupoids were introduced in [Jotz
et al. 2012] under the name of Glanon groupoids. Structures such as symplectic
groupoids and holomorphic Poisson groupoids are special instances of generalized
complex groupoids.

4. Dirac algebroids

In this section we study Lie algebroids equipped with Dirac structures compatible
with both the linear and Lie algebroid structure.

4A. Definition and main examples. Let A — M be a vector bundle. A Poisson
bivector w4 on A is linear if the map nf‘ : T*A — TA is a morphism of double
vector bundles. Similarly, a 2-form w4 on A is linear if the map a)i :TA—T*Aisa
morphism of double vector bundles. The bundle map a)i in this case covers a bundle
morphism A : TM — A*. As shown in [Konieczna and Urbarnski 1999], a linear
2-form w, on a vector bundle A — M is closed if and only if ws = —(A")*@can,
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where wq, is the canonical symplectic form on 7*M and A’ : A — T*M is a
fiberwise dual map of A : TM — A*. The definition below includes both linear
Poisson bivectors and linear closed 2-forms as special instances.

Definition 4.1. A Dirac structure L4 on A is called linear if L4 € TA is a double
vector subbundle of TA.

A linear Dirac structure L4 € TA is not only a vector bundle over A, but also a
vector bundle over a subbundle E C TM @ A*. It follows directly from the definition
that graphs of linear Poisson bivector and linear closed 2-forms define linear Dirac
structures. Linear Dirac structures arise also in connection with Lagrangian and
Hamiltonian mechanics, see for example, [Grabowska and Grabowski 2011].

Assume now that A — M carries also a Lie algebroid structure. Consider the
direct sum Lie algebroid TA = TA & T*A, whose base manifold is TM & A*.

Definition 4.2. A Dirac structure L4 on A is called morphic if L 4 is a linear Dirac
structure that is also a Lie subalgebroid of TA.

We denote by Diryorph (A) the space of morphic Dirac structures on the Lie
algebroid A.

A pair (A, L4), where A is a Lie algebroid endowed with a morphic Dirac
structure L 4, will be referred to as a Dirac algebroid.

Example 4.3. Let 74 be a linear Poisson bivector on a Lie algebroid A — M.
Then, the Dirac structure given by the graph of w4 is morphic if and only if
ni :T*A — TA is a Lie algebroid morphism. As shown in [Mackenzie and Xu
19941, this is equivalent to the pair (A, A*) being a Lie bialgebroid.

Example 4.4. Let w4 be a linear closed 2-form on a Lie algebroid A — M, that is,
wA = —0*Weqn, for some bundle map o : A — T*M. The Dirac structure defined
by the graph of w4 is morphic if and only if a)i :TA — T*A is a Lie algebroid
morphism. Equivalently, as shown in [Bursztyn et al. 2009a], the bundle map
o :A— T*M is an IM-2-form on A. The notion of IM-2-form was introduced
in [Bursztyn et al. 2004] motivated by the problem of the integration of Dirac
structures. See also [Arias Abad and Crainic 2011], where IM-2-forms arise in
connection with the Weil algebra and the Van Est isomorphism.

4B. More examples of Dirac algebroids. In addition to both morphic Poisson
structures and morphic closed 2-forms, there are more examples of morphic Dirac
structures, which we proceed to explain below.

4B1. Foliated algebroids. Let A be a Lie algebroid and F4 € TA an involutive
subbundle which is also a Lie subalgebroid of TA — TM. In this case we say
that (A, Fy) is a foliated algebroid. One can easily check that the Dirac structure
Fo® F; C TA is a morphic Dirac structure. Foliated algebroids were studied
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in [Hawkins 2008] as a way to promote the notion of polarization in geometric
quantization to the category of Lie algebroids. Also, a detailed discussion about
foliated algebroids can be found in [Jotz and Ortiz 2012].

4B2. Dirac Lie algebras. Let g be a Lie algebra. In this case, morphic Dirac
structures are Lie subalgebroids of Tg&® T*g — g*. It follows from [Ortiz 2008]
that Dirac Lie algebras are suitable pull-backs of Lie bialgebras.

4B3. Tangent lifts of Dirac algebroids. Let (A, L 4) be a Dirac algebroid. Consider
the tangent Dirac structure L4 on TA. By definition, the tangent Dirac structure
is given by L1g := (J4 ® O 4)(TL,), where TL4 — TM is the tangent algebroid
associated to the Dirac structure L4 viewed as a Lie algebroid over A. Since
the bundle map J4 @ Oy : TTAD TT*A — TTA @ T*TA is a Lie algebroid
isomorphism, we conclude that L4 C TTA is a Lie subalgebroid. Therefore, the
pair (TA, Lty4) is a Dirac algebroid.

4B4. Symmetries of Dirac algebroids. Let (A, L 4) be a Dirac algebroid. Consider
a Lie group H acting on A by Lie algebroid automorphisms. Assume that the
action is free and proper and that the H-orbits coincide with the characteristic
leaves of L 4. One can check that the orbit space A/H inherits a Lie algebroid
structure over M /H, making the quotient map A — A/H into a Lie algebroid
morphism. Since the H-orbits are exactly the characteristic leaves of L4, one
concludes that A/H is equipped with a unique Poisson bivector m.q determined by
the fact that A — A/H is a forward and backward Dirac map. Since L 4 is morphic,
we conclude that mq is @ morphic Poisson structure on A/H. In particular, due
to [Mackenzie and Xu 1994], the pair (A/H, (A/H)*) is a Lie bialgebroid. In the
special case where L 4 is the graph of a morphic Poisson structure on A and the
action is Hamiltonian in the sense of [Fernandes and Iglesias > 2013], this recovers
the reduction of Lie bialgebroids carried out in [Fernandes and Iglesias > 2013].

4BS. Morphic B-field transformations. Let (A, L 4) be a Dirac algebroid. Asso-
ciated to a morphic closed 2-form B4 on A is the Lie algebroid automorphism
g, - 1A — TA, (X,a) — (X,a +ixBa). The Dirac structure tp,(L4s) € TA
obtained out of L 4 by applying the B-field transformation tp, is morphic. Therefore,
the pair (A, tp,) is a Dirac algebroid. In particular, B-field transformations of mor-
phic Poisson structures (that is, Lie bialgebroid structures on (A, A*)) by morphic
closed 2-forms are always morphic Dirac structures. If the B-field transformation
is admissible, that is, the resulting Dirac structure is the graph of a Poisson bivector,
such a bivector is necessarily morphic as well. In particular, we get a new bialgebroid
structure on (A, A*) referred to as a gauge transformation of the Lie bialgebroid
(A, A*). Gauge transformations of Lie bialgebroids were introduced in [Bursztyn
2005] motivated by the study of gauge transformations of Poisson groupoids and
Morita equivalence of Poisson manifolds.
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4B6. Generalized complex algebroids. Let A — M be a Lie algebroid. Consider
the complexified Lie algebroid TcA = (TA & T*A) ® C whose base manifold
is (TM & A*) ® C. A generalized complex structure L4 on A is morphic if
L4 C TcA is a Lie subalgebroid. In this case, we say that (A, L) is a generalized
complex algebroid. The notion of generalized complex algebroid was introduced
in [Jotz et al. 2012] under the name of Glanon algebroids. Generalized complex
algebroids include holomorphic Poisson structures and holomorphic Lie bialgebroids
as particular cases.

5. Infinitesimal description of multiplicative Dirac structures

This section is the main part of the present work. Here we show that Dirac algebroids
correspond to the infinitesimal counterpart of Dirac groupoids.

5A. The canonical €si-groupoid. The main idea for studying multiplicative Dirac
structures infinitesimally is based on the following observation. Given a Lie
groupoid G over M, the canonical geometric objects associated to TG that are used
to define Dirac structures (symmetric pairing and Courant bracket) are suitably
compatible with the groupoid structure of TG. This compatibility makes TG into
a 6sd-groupoid. The notion of 6sd-groupoid was suggested by Mehta [2009] and
further studied by Li-Bland and Severa [2011]. More precisely, let (-, - )¢ be the
nondegenerate symmetric pairing on the direct sum Lie groupoid TG.

Proposition 5.1. The canonical pairing defines a morphism of Lie groupoids
(-, )g:TGHTG — R,
where R is equipped with the usual abelian group structure.

Proof. Since R is a groupoid over a point, we only need to check the compatibility
of (-, )¢ with the corresponding groupoid multiplications. For that, consider
elements (X, @ o), (Yo @ Be) € T,G and (X, ® ), (Y; ® B)) € T,G. Then by
definition of the groupoid structure on TG & TG, we have
(X ®atp) @ (Y @ By)) * (X, ® ) ® (Y, @ )

= (Xg’X;z Doy oay) @ (Y, Y, ® B ° B,

therefore one gets

(Xge X ®agoay), (Yee Y, @ BgoBy)),
= (agoa)(Ygo¥}) + (Bg 0 B)(Xg o X))
= g (Yg) +a;,(Yy) + Bo(Xg) + B,(X},)
= (X ®ay), Yy, B))G + (X}, D ay), (Y, @ B))6. O
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In order to explain the relation between the Courant bracket and the Lie groupoid
structure on the direct sum vector bundle TG =T G @ T*G, we consider the direct
product Courant algebroid TG x TG — G x G. Every section a® of TG x TG
can be written as

a® =ao pri®az o pry,

where ay, ap are sections of TG, and pry, pro: TG x TG — TG denote the natural
projections. The direct product bracket on sections of TG x TG is defined as usual;

[@®,a®] =[a1,allo pr1 @ laz, @l o pra,

and the anchor map p1G),, : TG X TG — TG x TG is given by the canonical
componentwise projection.

Proposition 5.2. Let mt : (TG)n) — TG denote the groupoid multiplication of
TG=TG®T*G. Ifa, b, a;, b; e T(TG),i =1, 2 are sections such that

mrto(ay,a) =aomg, mryo(by,by)=bomg,
then the following identities hold:
(@) Tmg(preye (X ®ag, Xj @) = Xy » X
(1) mto ([ai, b1, [laz, b21) = lla, bl omg.

Proof. We begin by checking (i). For that, consider a section a® =aqa;o pri®azopr;
of (TG)(), where a; = X'® o' and ap = X? @ o? are sections of TG. The
multiplication on the Lie groupoid TG maps the section a® into

mT(aj o pri ®azo pry)(g, h) = X;, -X% @aél, ooz%.
Applying the anchor map of TG we obtain
pr6(Xy o Xp @agow;) =X, 0 X

On the other hand, the componentwise anchor map of (TG)) applied to the
section a® gives rise to

PTG (a1 0 pri B azo pra)(g, h) = (X3, Xp),
which followed by the derivative of m¢g : G2y — G yields

Tm (praye (X ® oy, Xj @) = X« Xj,
as required. In order to prove identity (ii), one considers

9) mroa® =aomg,

(10) mroa® =aomg,
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where a®, a® ¢ 6o, ((TG) () and a, a € T'g(TG). More concretely, write down
sections as
a? = (X1 @al) opr1 @ (X2 @az) o pra,

a?® — ()?1 @&1) opri ® ()?2@&2) o pra,

a=Y®8,

a=Y®pB.
The identities (9), (10) then become
(11 X, o X; ® oy o, =Y @ Bon,
(12) Xyo X, @ayo0a;, =Yg @ Ban

for any composable pair (g, ) € G x G. Now it follows directly from the definition
of the direct product bracket that

@@, a®]

= (X" X"loLya' —igda')opri & ([X*, X1 ® Lx2a" — igada®) o pra.
Then, composing with the groupoid multiplication of TG, we have
myo[a®,a® e

=[X", X' o [ X%, X211 ® (Ex1@' —igida')g o (Lx2@® — igada?)y.
On the other hand,
la,allomg(g, h) =Y, Ygn ® (Ly B — izdB)en,
and using the identities (11) and (12) one concludes that
[V, Y]gn = [X', X'Ig o [X?, X*11.

Thus, the tangent component of [[a, ally, coincides with the tangent component
of mt o [a?, 5(2)](& n). It remains to show that we also have the equality of the
corresponding cotangent parts. This is equivalent to showing that

(LyB—LyB—d(B.Y))gn

= (§EX15{1 — .58;1051 — d(al, fl))g o (gxz&z — 55)?2062 — d(Otz, )?2))h,
for every composable pair (g, 1) € G(2). In order to prove this identity, we need to
check that the left hand side (LHS), and the right hand side (RHS) above coincide
at elements of the form U, ¢ V},. For that consider the 1-form on G defined by

Yy =%yp —FyB—d(B, Y). We can look at the pull-back 1-form mgy € QI(G(z)),
which at every tangent vector (Uy, Vj,) € T4 )G 2) is given by

(m&Y) gy Uy, Vi) = ven(Ug o Vi) = (LHS)(Ug o V).
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The pull-back form mg;y involves three terms. Let us analyze the first term
mg, (Ly B) of this pull-back form. It follows from the relation ¥ = (mg).(X 1 x?
that

me;(Ly B) =L x1 x2ymGB-
Notice that (12) implies that

(MEB) gy Uy Vi) = Bon(Ug » Vi) = @y 0 @})(Ug » Vi)
=T, (Up) + @, (Vi) = @', @) (g1 (U, Vi)

That is, m¢;,(£y B) = Lyia' ® Ly2a>. A similar argument can be applied to the
other terms of the pull-back form m{;y, yielding

(LHS)(Ug o Vi) = (mgy ) (g.n)(Usg, Vi)
= (Ex1@")g(Uy) + (Lx2t)p (Vi) — (Lxia) g (Uy)
— (L) (Vi) —d{a', X')(Uy) —d(a®, X*)n (Vi)
= (RHS)(Ug » V).

Thus RHS and LHS coincide at elements of the form U, ¢ V},, and we conclude
that (mT, mg) is bracket preserving. O

Recall that, given a Courant algebroid (E, p, [ -, - ]I) over smooth manifold M
and a submanifold Q C M, a Dirac structure supported on Q (see [Alekseev and
Xu 2011; Bursztyn et al. 2009b]) is a subbundle K C [E|p such that K, C E, is
Lagrangian for all x € Q and the following conditions are fulfilled:

(1) p(K)CSTOQO;
(2) whenever ay, ap € I'(E) satisfy ai|g, az|gp € I'(K), then [[ai, ax]l|p € T'(K).

Dirac structures with support were used in [Bursztyn et al. 2009b] to introduce
a natural notion of morphism between Courant algebroids. Let E;, E, be Courant
algebroids over M, N, respectively. A Courant algebroid morphism from E; to E; is
a Dirac structure in E; x E; supported on Graph( f), where f : M — N is a smooth
map. Here E; denotes the Courant algebroid structure on the vector bundle E; with
the same bracket on I'(E;), anchor map and minus the usual symmetric pairing.
Combining Propositions 5.1 and 5.2, we obtain:

Proposition 5.3. Let G be a Lie groupoid over M with multiplication map mg :
G@)— G. Let my : (T G) o) — TG denote the groupoid multiplication on TG. Then
Graph(mt) C TG x TG x TG is a Dirac structure supported on Graph(mg) C
G x G x G. That is, Graph(mT) is a Courant algebroid morphism from TG x TG
to TG.
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Using the terminology of [Li-Bland and Severa 2011], Proposition 5.3 says
that TG with its canonical Courant algebroid structure and groupoid multiplication
is an example of €s{-groupoid. See also Example 2.3.1 of [Li-bland 2012].

5B. The ¥sd-groupoid of a multiplicative Dirac structure.

5B1. Review of -groupoids. An Ld-groupoid is a Lie groupoid object in the
category of Lie algebroids. More precisely, an £dA-groupoid [Mackenzie 1992] is
a square

qH

H G

(13)

qE
E——7—M,

where the single arrows denote Lie algebroids and the double arrows denote Lie
groupoids. These structures are compatible in the sense that all the structure
mappings (that is, source, target, unit section, inversion and multiplication) defining
the Lie groupoid H are Lie algebroid morphisms over the corresponding structure
mappings which define the Lie groupoid G. We also require that the anchor map
pn : H — TG be a groupoid morphism over the anchor map pr : E — TM.
Here T G is endowed with the tangent groupoid structure over 7M. For describing
the square given by an ¥s-groupoid we use the notation (H, G, E, M). It is
worthwhile to explain how the groupoid multiplication defines a morphism of Lie
algebroids. For that, letmpy : Hoy € H x H — H denote the groupoid multiplication
of H, and similarly let m¢g : G2y € G x G — G denote the multiplication of G.
The direct product vector bundle H x H — G x G inherits a natural Lie algebroid
structure, and we have a Lie subalgebroid Hy) over G (o) which is just a pull-back
algebroid, see for example, [Higgins and Mackenzie 1990] for details about the
pull-back operation in the category of Lie algebroids. With respect to this Lie
algebroid structure, the multiplication map m g is required to be a Lie algebroid
morphism covering mg.

The Lie functor applied to an £-groupoid (13) determines a double vector

bundle

Algn)
AH — AG

(14)

qdE
E——>M,

where each of the arrows define Lie algebroids. The top Lie algebroid structure
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is nontrivial, and it deserves a detailed explanation. The Lie algebroid structure
AH — AG was constructed in [Mackenzie 2000] as a prolongation procedure
similar to the tangent prolongation of a Lie algebroid, except that we replace the
tangent functor by the Lie functor.

Definition 5.4. The prolonged anchor map AH — T (AG) is defined by
pi=jg' oAlpn),
where jg : T(AG) — A(T G) is the canonical identification defined in Equation (5).

Now we study the space of sections I'yg(AH).

Definition 5.5. A section u € ' (H) is called a star section if there exists a section
ug € I'yy (E) such that

(1) EEOU)=UOCEY,
(2) syou =ugosg.
Notice that since every star section u : G — H preserves the units and the source

fibrations, we are allowgd to apply the Lie functor to u, yielding a section A(u) of
the vector bundle A H Alam), AG.

Definition 5.6. Let (H, G, E, M) be an ¥£s{-groupoid. The core of H is the vector
bundle over M defined by
K := ey ker(sy).

Every section k € I'(K) induces a section kg € I'g(H) in the following way:
ki (g) = k(16 (8))0L,

where 0? is the zero element in the fiber H, above g € G. Notice that for every
section k € I'(K) the induced section ky € I'g (H) satisfies

kH OEMIk.

It was proved in [Mackenzie 2000] that the core of the double vector bundle
(AH, AG, E, M) is the vector bundle K — M. Notice that a core element k € K
induces a Lie algebroid element k € AH. Indeed, we observe that every element

in A H has the form J

W:E

(ht)|t=0,

where h; is a curve in H sitting in a fixed source fiber s;ll(e) with hg = €g(e).
Thus, for every core element k € K above x € M —that is, sy (k) = Of and
qu (k) = €)1 (x) —there exists a natural element k € AH, defined by

- d
k= (k) i—o.
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Definition 5.7. Given a section k € I'(K), the core section induced by k is the
section k°°"® € T'yg (A H) defined by

K () := A )u, +k(x).

Proposition 5.8 [Mackenzie 2000]. The space of sections ' ag(AH) is generated
by sections of the form A(u), where u : G — H is a star section, and by sections of
the form k', where k : M — K is a section of the core of H.

The Lie bracket on I"'yg(AH) is defined in terms of star sections and core
sections. First we observe that whenever u, v € I'¢(H) are star sections, then the
Lie bracket [u, v] € I'g(H) is also a star section. Thus the Lie bracket between
sections of the form A(u), A(v) is defined by

[AG), A()] = A([u, v]).
The bracket of a pair of core sections is defined by
[kiore kgore] — 0

In order to define the bracket of a star section and a core section we notice that
every star section # : G — H induces a covariant differential operator

D,:T(K)—=T'(K), k> lu,kyloey.

Now we define [A(u), k] = (D, (k))°*.
The Lie bracket of other sections of I'yg(AH) is defined by requiring the
Leibniz rule

[w, fwl= flw, w]+ (Lsw HHw'.

The vector bundle A H A, AG endowed with the anchor map

p=lJg oAp)

and the Lie bracket [ -, -] on I'yg(AH) becomes a Lie algebroid called the pro-
longed Lie algebroid induced by H — G, see [Mackenzie 2000].

Although the following remark is not mentioned in [Mackenzie 2000], it is
important to notice that Mackenzie’s construction of the prolonged Lie algebroid is
natural in the following sense.

Proposition 5.9. Let (H, G, E, M) be an £4-groupoid. Consider the canonical
embeddings iag : AH — TH andipg : AG — TG. Endow TH — T G with the
tangent algebroid structure and AH — AG with the prolonged algebroid structure.
Theniag is a Lie algebroid morphism covering ig.
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Recall that (see for example, [Mackenzie 2005]) a vector bundle map W : A — B,
covering ¥ : M — N, is a Lie algebroid morphism if

ppoVW =Ty opy,

and the following compatibility with brackets holds: For sections u, v € I'(A)
such that ¥ (u) = Zj fiv*ujand W (v) =), giy*v;, where f;, gi € C*°(M) and
uj,v; € I'(B), we have

(15) W(u,v1) =D fi8iv Tuj. vilat Y Lo 8™ vi— Y Lpuw ¥ uj.
i,j i J
Proof. The compatibility with the anchor maps reads
prHoiag =Tisc o p,

which is exactly the definition of the prolonged anchor map.

Let us check now the compatibility with the Lie brackets. For that, consider a star
section u : G — H. Then, there are sections Tu : TG — TH and A(u) : AG — AH.
Both are related by A(u) = Tu|ag. In particular, igg o A(u) = Tu oisg holds.
Similarly, every section k € I'(K) of the core of H induces a section of the tangent
prolongation TH — T G. Indeed, first consider the induced section kg € I'g(H)
and then construct the core section IQH € I'r¢(TH) defined in the usual way:

kun(Xg) =T(O0") X, +ku(g).

For every x € €)y (M) C G one has kg (x) =k(x), and thus at any u, € (AG), €T, G
we get
ke (uy) = A"y, +k(x).

Hence we conclude that i 4y 0 k% = IQH oisg. Let us show that (15) holds for a
pair of sections A(u), A(v), where u, v: G — H are star sections. Indeed,

iagol[Am), A(w)] =iggoAlu,vl=T[u,v]oisg =[Tu, Tv]oiag,

as desired. It remains to show the bracket condition (15) for sections of the form
A(u), k", where u : G — H is a star section and k : M — K is a section of the
core. On the one hand, one has that

iam o [Au), k] =isg o (Dk)* = (Dk)y oiac.

On the other hand,
[Tu,kyloiac =[u, knloiac.

Notice that to conclude that (15) holds in this case it suffices to show that
(Dyk)g oisc = [u, kgl oisc. Indeed, using the fact that k = kg o € for every
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section k : M — K, we conclude that if v, € A, G, then
— d
[, k1) = TOG (1) + - (¢, kr 100)) =0

= T0H (u,) + %(I(Duk)H(x))h:O = (Duk) 11 (vy). O

5B2. Dirac groupoids as £A-groupoids. Let L be a multiplicative Dirac structure
on a Lie groupoid G == M. This means that we have a V'%B-subgroupoid Ls =2 E of
TG =TM®A*G, such that L C TG is also a Dirac subbundle. In particular there
is a canonical Lie algebroid structure on L — G with anchor map Lg — T G the
natural projection and Lie bracket [ -, - ] on ['¢(L¢). Given sections eq, e; of E,
there exist star sections aj, a; of Lg covering e and ey, respectively. Since Lg is
involutive with respect to the Courant bracket, we conclude that [[a;, a] is a star
section of L covering a section e of E. We define [e], e2] := e. A straightforward
computation shows that with respect to this Lie bracket and the natural projection
E — TM, the vector bundle E — M becomes a Lie algebroid.

Proposition 5.10. A multiplicative Dirac structure L on G gives rise to an £HA-
groupoid

pPG®cg
Log—=G

(16)

qE
E——M,

where pg and cg denote the tangent projection and the cotangent projection,
respectively.

Proof. Since the structure mappings defining the Lie groupoid Lg =2 E are re-
strictions of the structure mappings of the tangent and cotangent groupoids, a
straightforward computation shows that these structure mappings are Lie algebroid
morphisms over the structure mapping of G. The fact that the multiplication
on Lg is a Lie algebroid morphism over the multiplication on G follows from
Proposition 5.2. An argument similar to the one used in the proof of Proposition 5.2
shows that the inversion map on L is a Lie algebroid morphism. ([

5C. The Lie algebroid of a multiplicative Dirac structure. We let G be a Lie
groupoid over M with Lie algebroid AG. Let L be a multiplicative Dirac structure
on a Lie groupoid G. According to Proposition 5.1, the canonical pairing (-, - )¢ :
TG ®TG — R is a Lie groupoid morphism. Applying the Lie functor yields a
nondegenerate symmetric pairing

A((+, ")) 1 (A(TG)® A(T*G)) xa6 (A(TG) ® A(T*G)) — R.
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Let (-, -)ac denote the canonical nondegenerate symmetric pairing on T(AG).
Recall that there exist canonical isomorphisms of Lie algebroids jg : T(AG) —
A(TG) and j; : A(T*G) — T*(AG) (see (5) and (6)). Since (-, )¢ is justa
suitable restriction of T'( -, - ), one concludes that the canonical map

JG'®ji: A(TG)® A(T*G) — T(AG) ® T*(AG)

is a fiberwise isometry with respectto A((-, - )g) and (-, - ) 4. This is a useful tool
for transporting Lagrangian subbundles of TG & T*G to Lagrangian subbundles of
T(AG)®T*(AG). For instance, given a ¥V'%B-subgroupoid L of TGHT*G, we can
apply the Lie functor to obtain a V"%-subalgebroid A(Lg) CA(TG)DA(T*G). We
mimic the construction of tangent Dirac structures, giving rise to a V"®B-subalgebroid
of T(AG) & T*(AG) defined by

Lac = (jg' ® Jj6)(A(Lc))-
The following result is a straightforward consequence of the previous discussion.

Proposition 5.11. Let L C TG ® T*G be a VB-subgroupoid. Consider the
associated V' B-subalgebroid L s C T(AG) ® T*(AG). Then Lg is isotropic with
respect to (-, - )g if and only if L o is isotropic with respect to { -, - ) oG-

In particular, if L € TG & T*G is a V'®B-subgroupoid with associated V'%B-
subalgebroid L4 € T(AG) ® T*(AG) then L is an almost Dirac structure on G
if and only if L 4 is an almost Dirac structure on AG.

Now we want to deal with integrability issues. For that, consider a multiplicative
Dirac structure Lg C TG and let (Lg, G, E, M) be the associated £s{-groupoid.
Applying the Lie functor we obtain the prolonged Lie algebroid structure on
A(Lg) — AG, and we use the canonical map

jg;l ®j;: ATG)BA(T*G) > T(AG)®T*(AG)

to define a Lie algebroid Lac = (j; 'g jé;)(A(Lg)) over AG, characterized by the
fact that j(;] &) j’G : A(Lg) = L4¢ is a Lie algebroid isomorphism. We have seen
that Lo € T(AG) is a Lagrangian subbundle with respect to the canonical pairing
(+,-)ac on T(AG). We claim that the Lie bracket on I' 4 (L 4) induced by the
prolonged Lie bracket on I' 4 (A(Lg)) coincides with the Courant bracket. Indeed,
since the tangent Lie algebroid 7L — T G is isomorphic to Ly — T G, where the
latter is equipped with the algebroid structure induced by the tangent Dirac structure
Ly¢ CTTG®T*TG, and A(Lg) is a Lie subalgebroid of TL s (Proposition 5.9),
then the bracket on sections of L 4 induced by the identification A(Lg) = L ag is
exactly the restriction of the Courant bracket on I'(T (AG) & T*(AG)). We have
proved:
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Theorem 5.12. Given a Lie groupoid G with Lie algebroid AG, there is a canonical
map

Dityyit(G) = Ditmorph(AG), Lg + Lag := (jg' @ j5)(A(L)).

That is, up to a canonical identification, the Lie algebroid of a multiplicative Dirac
structure Lg C TG defines a Dirac structure L on AG which is also a Lie
subalgebroid of T(AG).

It is interesting to observe that since L4 is the Lie algebroid of the -
groupoid Lg, in particular L ¢ inherits the structure of a double Lie algebroid
[Mackenzie 2000]. Double Lie algebroids were introduced by Mackenzie [2011] as a
way to understand Drinfeld’s doubles of Lie bialgebroids. As a result, multiplicative
Dirac structures provide interesting examples of double Lie algebroids.

5D. Dirac groupoids vs. Dirac algebroids. This section is concerned with the
statement and proof of the main result of this work. We will prove that, whenever G
is a source simply connected Lie groupoid with Lie algebroid AG, then the map in
Theorem 5.12 is a bijection.

For that, recall that if M is a smooth manifold and L C TM is a Lagrangian
subbundle, then there is a well-defined element ; € I'( /\3L*) given by

(17) wr(ai, az, az) = ([la, azll, az).

The element 1}, € F(/\3L*) is referred to as the Courant 3-tensor of L. Notice
that a Lagrangian subbundle L C TM is a Dirac structure if and only if ¢, vanishes.

Proposition 5.13. Let G be a Lie groupoid over M. Consider a Lagrangian sub-
bundle L C TG & T*G, which is also a Lie subgroupoid. Then, the Courant
3-tensor of L is multiplicative; that is,

3
MLg - l_[ LG —- R
LS el

is a groupoid morphism.

Proof. Let us consider composable pairs aé, a ,i in Lg withi =1, 2, 3. Set cfgh =
mqy(aé, &,i) € (Lg)gn, for i = 1,2,3. Choose a section ¢t € T'(Lg) such that
c'(gh) = c;h. Since L¢ is a V'®B-groupoid, the multiplication on L is fiberwise
surjective. In particular, there exist sections a’, @' € I'(L¢) such that myo(a’,a’) =
' omg, for every i = 1,2, 3. Clearly a'(g) = aj, and a' (h) = aj,fori=1,2,3.

Then,

/-’LLG ((Cl;, a§7 ag) * (a}lp a]%p (/_12)) = /-’LLG (céhv czha C;h) = ([[Cls Cz]](gh)a C3(gh)>
= (mr([a® a1, [a', a*1) (g, h), my(a® @) (g, b))
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The last identity follows from the fact that (m, m¢) is a Courant morphism (see
Proposition 5.2). Now we use the fact that (-, - ) is a groupoid morphism to
conclude that

i ((ay. a. a)) = @y, aj. ay)) = prg(ay. ag. a) + pur, @, ay. a).
This proves that the function w1z, is multiplicative. O
We would like to describe explicitly the Lie algebroid morphism induced by the
multiplicative tensor pr, : ]_[;G Bec L — R. For that, we need the next lemma.
Lemma 5.14. Let M be a smooth manifold. Consider a Lagrangian subbundle
Ly C TM. Then, for every (a1, az, az) € TLy the following identity holds:

Tiipy, (a1, a2, a3) = pppy, ((Ju ® Ondar, (Ju @ Oy)az, (Ju @ Op)az),
where Ly C T(TM) is the tangent lift of Ly.

Proof. One has Tur,, (Tar, Tax, Taz) =T (L, (a1, az, as)) for every ay, az, a3 €
a7 (Lyr). On the other hand, the canonical map Jy; @ ®,, applied to each of the
sections Tay, Tay, Tas gives al ,a) ,al € T'ray(Lry). Thus we conclude that

Urn (@l ay,al) = (la],alll,ai)ru = (a1, azll, az) )",

which is exactly the tangent functor applied to the function uy,, (a1, a2, az). There-
fore, for every triple of sections aj, as, az of Ly, we get

(18) Tur,(Tai, Tay, Tas) = pup,,(al ,ai,ai).

Now we notice, using local coordinates, that for every point ¢ € TL,; above
X € TM there exists a section a € I'y;(Lys) such that Ta(x) = a, where Ta €
Ira(TLyy) is the section obtained by applying the tangent functor to the section a
of L. This fact together with identity (18) prove the statement. ([

As a consequence we obtain a direct proof of the Courant integrability of the
tangent lift of a Dirac structure Ly, on M.

Corollary 5.15. Let Ly be an almost Dirac structure on M, and consider the
induced almost Dirac structure Lty on TM. Then Lty is Courant integrable
if Ly is Courant integrable.

Now consider a multiplicative Dirac structure Lg on G. The application of
the Lie functor to the groupoid morphism p;, of Proposition 5.13 yields a Lie
algebroid morphism

3
Ay [ Ao —»R
A(pc®ee)

Since A(ur,) =T wrslawg), we conclude:
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Proposition 5.16. For the Lagrangian subbundle Lac = (jg ' JG)A(Lg) €
T(AG), we have

A(uLy) = pr,g 0 g @6,

where (j(;1 @ j’G)(3) : Hi(pGEBCG) A(Lg) — H;AG@CAG L sg denotes the natural
extension of (jc_;l ® j;)-

Proof. This follows directly from Lemma 5.14 and the fact that j; and j; are
suitable restrictions of Jg and O, respectively. ]

Now we are ready to state the main theorem of this work.

Theorem 5.17. Let G be a source simply connected Lie groupoid with Lie alge-
broid AG. There is a one-to-one correspondence between multiplicative Dirac
structures on G and morphic Dirac structures on AG. The correspondence is given
by the map in Theorem 5.12.

Proof. Let L be amultiplicative Dirac structure on G. Consider the Lagrangian sub-
bundle L s := (jc_;l ® j;)(A(Lg)) C TAG. Since jur; =0, then Proposition 5.16
implies that wuy,, = 0. Thus, L4¢ is a Dirac structure on AG which is clearly
morphic. Notice that the integrability of L 4¢ is also a consequence of Theorem 5.12.
Conversely, consider an element L 4 € Diryorph (AG); thus Ly is a linear Dirac struc-
ture on AG such that Ly, € TAG is a V'%B-subalgebroid. Since G is source simply
connected, TG is the source simply connected Lie groupoid which integrates the
Lie algebroid TAG. As explained in [Bursztyn et al. > 2013], the V"%®B-subalgebroid
L4 € TA integrates to a source simply connected V'%-subgroupoid L € TG. We
will prove that L¢ is a multiplicative Dirac structure on G. Since Ly C TAG is
Lagrangian with respect to the canonical symmetric pairing (-, - )4 on TAG, we
conclude from Proposition 5.11 that L is Lagrangian with respect to the canonical
symmetric pairing (-, - )¢ on TG. It remains to show that L C TG is integrable
with respect to the Courant bracket. Equivalently, we have to prove that the Courant
3-tensor pp,; € F(/\3L”é) is zero. Since L4 € TAG is a Dirac structure, the induced
Courant 3-tensor (i1, € F(/\3LZ) vanishes. Therefore, combining Proposition 5.16
(applied to the zero Lie algebroid morphism) with Lie’s second theorem we conclude
that uy, =0, as desired. This shows that L is a Dirac structure on G, which by
definition is multiplicative. O

Remark 5.18. Theorem 5.17 provides a direct proof of the Notice that integrability
of the Lagrangian subbundle L 6 C T(AG) associated to a multiplicative Dirac
structure L C TG, without using the theory of £sd-groupoids. In spite of this,
we believe that the fact that L 4 inherits the structure of a double Lie algebroid is
interesting in itself. This relies on the observation that L is an ¥s{-groupoid.
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5E. Main examples revisited. We have shown several examples of Dirac groupoids
and Dirac algebroids. See Sections 3 and 4, respectively. Here we will see that
both classes of examples are related by the construction explained in Section 5C.
Throughout this subsection G denotes a Lie groupoid over M with Lie algebroid AG.

SE1. Poisson groupoids and Lie bialgebroids. Consider a multiplicative Poisson
bivector g on G. It is well known that in this case M C G is a coisotropic
submanifold and, in particular, the conormal bundle N*M = A*G inherits a Lie
algebroid structure. The Dirac structure Ls on G defined by the graph of ng
is a multiplicative Dirac structure. The multiplicativity of this Dirac structure
is equivalent to ng : T*G — TG being a morphism of Lie groupoids, and the
associated Lie algebroid morphism coincides, up to identifications, with ngG :
T*(AG) — T (AG), where 4 denotes the linear Poisson bivector on AG dual to
the Lie algebroid A*G. One concludes that the corresponding Dirac structure L4
on AG is exactly the graph of m4g. Since L4¢ is a Lie subalgebroid of TAG,
the bundle map ”/jx(; : T*(AG) — T(AG) is a Lie algebroid morphism. This
is equivalent to saying that (AG, A*G) is a Lie bialgebroid. As a corollary of
Theorem 5.17 we obtain:

Corollary 5.19 [Mackenzie and Xu 2000]. Let G be a source simply connected Lie
groupoid with Lie algebroid AG. There is a one-to-one correspondence between
multiplicative Poisson bivectors on G and Lie bialgebroid structures on (AG, A*G).

5E2. Multiplicative 2-forms and IM-2-forms. Assume that wg € Q*(G) is a mul-
tiplicative closed 2-form on G. The Dirac structure Ls given by the graph of
a)é : TG — T*G is multiplicative. In this case, the corresponding Dirac struc-
ture L4 on AG is given by the graph of the closed 2-form wsg := —0*Wean,
where 0 : AG — T*M is defined by o (u) = i,wg|rm. Since the Dirac struc-
ture L,g is a Lie subalgebroid of T(AG), we conclude that the bundle map
wiG :T(AG) — T*(AG) is a Lie algebroid morphism. As shown in [Bursztyn et al.
2009a], this is equivalent to the bundle map o : AG — T*M being an IM-2-form
on AG; that is, for every u, v € I'(AG), the following conditions hold:

s (o), pac(v)) = —(0 (v), pac(u));
s oflu,v]=%p,,w0 W) —Ep,600 W) +d{o ), pacv)).
As a corollary of Theorem 5.17, we get:

Corollary 5.20 [Bursztyn et al. 2004]. Let G be a source simply connected Lie
groupoid with Lie algebroid AG. There is a one-to-one correspondence between
multiplicative closed 2-forms on G and IM-2-forms on AG.

SE3. Foliated groupoids and foliated algebroids. Let Fg € T G be a multiplicative
involutive subbundle. Then, the Dirac structure Lg = Fg @ F; is multiplicative.
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The corresponding Dirac structure L 4 on AG associated to L is given by L 4 =
Fac ® Fi; C T(AG), where Fpg := jgl(A(FG)) C T(AG). Since Lyg is a
Dirac structure which is also a Lie subalgebroid of T(AG), we conclude that
Fac € T(AG) is an involutive subbundle which is also a Lie subalgebroid of
T(AG) — TM. We refer to such a subbundle as a morphic foliation on AG. As a
corollary of Theorem 5.17, we obtain the next result.

Corollary 5.21 [Hawkins 2008]. Let G be a source simply connected Lie groupoid
with Lie algebroid AG. There exists a one-to-one correspondence between multi-
plicative foliations on G and morphic foliations on AG.

As shown in [Hawkins 2008; Jotz and Ortiz 2012], having a morphic foliation
on AG is equivalent to AG be equipped with an IM-foliation, that is, a triple
(Fy, K, V) where Fy; C TM is an involutive subbundle, K € AG is a Lie subal-
gebroid with psg(K) C Fy, and V is an Fjs-connection on AG/K satisfying the
following conditions:

o Vis flat.

If u e I'(AG) satisfies Vr(r,,)(u + K) € I'(K), then [u, I'(K)] C I'(K).

o If u,v € I'(AG) are such that Vrg,(u + K), Vrr,)(v + K) € I'(K), it
follows that Vr(r,,)([u, v]+ K) € I'(K).

If u € I'(AG) satisfies Vr(r,)(u + K) € T'(K), then [pag(u), I'(Fp)] €
'(Fy).

The properties as above determine completely the morphic foliation F4; on AG.
In particular, Dirac structures of the form L = Fac ® Fj are in one-to-one
correspondence with IM-foliations. Additionally, there exists a conceptually clear
interpretation of IM-foliations in terms of representations up to homotopy. See
[Drummond et al. 2013] for more details.

SEA4. Dirac Lie groups and Dirac Lie algebras. Let G be a Lie group with Lie
algebra g and let L € Dirpy(G) be a multiplicative Dirac structure. Consider
the Dirac structure Ly on g associated to L. It was shown in [Ortiz 2008] that
ker(Lg):=LsNT G is aregular involutive subbundle of 7' G, in particular ker(Ly) =
Jo 1(A(ker(LG))) is an involutive subbundle of T'g. Since ker(L,) is a linear
foliation on g, that is, multiplicative with respect to the abelian group structure on g,
then the leaf through O € g is a vector subspace h € g. The other leaves are affine
subspaces of g modeled on b. In particular, the space of characteristic leaves of L
coincides with the quotient space g/h. The fact that L, C Tg is a Lie subalgebroid
implies that i C g is an ideal. Therefore, the space of characteristic leaves g/b
of L4 inherits a unique Lie algebra structure making the quotient map ¢ : g — g/b
into a surjective Lie algebra morphism. Since g/f is the space of characteristic
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leaves of Lg, there is a unique Poisson structure 7 on g/h making the quotient map
¢ : g — g/b into a forward and backward Dirac map. Since L is a morphic Dirac
structure, we conclude that 7 is a morphic bivector on g/b. In particular, the pair
(g/b, (g/h)*) is a Lie bialgebra. Conversely, given a Lie algebra g and an ideal
h C g such that (g/b, (g/h)*) is a Lie bialgebra, then the linear Poisson bivector 7
on g/b is morphic. The surjective Lie algebra morphism g — g/h induces a Dirac
structure Ly on g (the pull-back of 7) which is morphic as well. We have proved
the following result.

Proposition 5.22. Let g be a finite-dimensional Lie algebra. There is a one-to-one
correspondence between

(1) morphic Dirac structures on g, and

(2) ideals by C g such that (g/h, (g/h)*) is a Lie bialgebra.
The proposition above recovers the results of [Ortiz 2008].

SES. Tangent lifts of Dirac structures. Let L be a multiplicative Dirac structure
on G. Consider the associated morphic Dirac structure L 4 on the Lie algebroid of
G. We can lift L to a multiplicative Dirac structure on the tangent groupoid 7 G.
Similarly, as explained in Section 4B3, the morphic Dirac structure L 4 can be lifted
to a morphic Dirac structure L7 (ag) on the tangent Lie algebroid T(AG) — TM.
It is straightforward to check that the morphic Dirac structure on 7 (AG) associated
to L7¢ as in Theorem 5.17 coincides with the tangent lift L7ac) of Lag. That is,
the tangent functor commutes with the Lie functor.

S5E6. Symmetries of Dirac groupoids. Let Lg be a multiplicative Dirac struc-
ture on G. Consider the associated morphic Dirac structure Ly on AG as
in Theorem 5.17. Let H be a Lie group acting freely and properly on G by
groupoid automorphisms @, : G — G, h € H. Applying the Lie functor to each
®;, : G — G yields a free and proper H-action on AG by Lie algebroid automor-
phisms A(®y,) : AG — AH, h € H. Assume that the H-orbits of G coincide
with the characteristic leaves of L. Then, the H-orbits of AG coincide with the
characteristic leaves of L 4. We have shown that in this situation we can endow
the space of characteristic leaves G/H of L with a unique multiplicative Poisson
bivector 7,y making the quotient map G — G/H into a forward and backward
Dirac map. Similarly, the space of characteristic leaves AG/H of L 4 inherits a
unique morphic Poisson structure 46,5 making the quotient map AG — AG/H
into a forward and backward Dirac map. One can easily see that the morphic Dirac
structure L 4G /p associated to g,y as in Section SE1 coincides with the morphic
Dirac structure on AG/H given by the graph of m4,n. As a consequence, the Lie
bialgebroid of (G/H, mg/n) is exactly (AG/H, (AG/H)*).
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SE7. B-field transformations. Let Lg be a multiplicative Dirac structure on G.
Assume that Bg is a multiplicative closed 2-form on G. Consider the Dirac
structure Lg on G, obtained out of L by applying the B-field transformation
with respect to Bg. As observed in [Bursztyn et al. 2009a], every multiplicative
closed 2-form on G induces a morphic closed 2-form Bsg on AG. A direct
computation shows that the morphic Dirac structure Lﬁ ¢ corresponding to Lg (as
in Theorem 5.17) is given by the B-field transformation of L 4 with respect to
B4g, in agreement with [Ortiz 2012].

5E8. Generalized complex groupoids. Let Lg C TG be a multiplicative general-
ized complex structure on G. The construction explained in Theorem 5.12 applies
also to the case of multiplicative generalized complex structures. As a result, there
is a morphic Dirac structure L C TcAG given by L g := (j(;1 ® j;)c(A(Lg)),
where (j; e j&)@ : A(TeG) — Te(AG) denotes the complexification of the
canonical isomorphism (jG_1 ®j;): A(TG) — T(AG). Observe that Ly S TcAG
is in fact a generalized complex structure making the pair (AG, L 4¢) into a gen-
eralized Lie algebroid. For that, we only need to check that Lsg N Laig = {0}.
Indeed, one easily checks that the conjugation map (- )¢ : TcG — T¢G is a Lie
groupoid isomorphism. Therefore, the generalized complex structure Lg on G
is also multiplicative. Since TcG = L @ L, the application of the Lie functor
yields a decomposition

(19) A(TeG) = A(LG) ® A(Lg).

Straightforward computation shows that the Lie algebroid isomorphism A((-)¢)
A(TcG) - A(TcG) satisfies

(o' ®j6)co A()e) = (Dacs

where the map of the right hand side of the identity above is the conjugation map
Tc(AG) — Tc(AG). Hence, applying the canonical isomorphism (j; '® jé;)@ :
A(TcG) — Tc(AG) on both sides of (19), gives rise to

TcAG = Ly @ZA(;.

Therefore, L 4 is transversal to L 4 and we conclude that L 4 is a morphic
generalized complex structure. In this situation, Theorem 5.17 gives rise to the
following result.

Proposition 5.23 [Jotz et al. 2012]. Let G be a source simply connected Lie
groupoid with Lie algebroid AG. There is a one-to-one correspondence between
multiplicative generalized complex structures on G and morphic generalized com-
plex structures on AG.
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6. Conclusions and final remarks

This work can be considered as the first step toward describing multiplicative Dirac
structures infinitesimally. We have seen that every multiplicative Dirac structure L¢
on a Lie groupoid G induces a Dirac structure L 4 on its Lie algebroid AG which
is compatible with the algebroid structure in the sense that L4 C T(AG) is a
Lie subalgebroid. Notice that in the special situation of Poisson groupoids (resp.
multiplicative closed 2-forms, multiplicative foliations) the induced Dirac structure
on AG is equivalent to endowing (AG, A*G) with a Lie bialgebroid structure
(resp. IM-2-form, IM-foliation). Therefore, it would be interesting to introduce
a suitable notion of IM-Dirac structure, providing a more explicit description of
Dirac structures compatible with a Lie algebroid, unifying different infinitesimal
structures such as Lie bialgebroids, IM-2-forms and IM-foliations. This study will
be part of a future work.
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ON THE FINITE GENERATION OF
A FAMILY OF EXT MODULES

TONY J. PUTHENPURAKAL

Dedicated to Professor L. L. Avramov on the occasion of his sixtieth birthday.

Let (A, m) be a local complete intersection ring. Let M, N be finitely gen-
erated A-modules and let I be an ideal in A. We show that

JUAssExt (M, I"N)
n>0i>0
is a finite set. We also show that there exist iy, ny such that for all i > i, and
n > ng we have
AssExt¥ (M, I"N) = AssExt;" (M, I"'N),
AssExt? (M, I"N) = AssExt;"*' (M, I"N).

We prove analogous results for complete intersection rings which arise in
algebraic geometry. We also prove that the complexity, cx(M, I"N), is con-
stant for all n > 0.

1. Introduction

Let A be a Noetherian ring. Let / be an ideal in A and let M be a finitely generated
A-module. M. Brodmann [1979] proved that the set Ass4 M /1" M is independent
of n for all large n. This result is usually deduced by proving that Ass, I"M/I" ' M
is independent of n for all large .

We state some generalizations of Brodmann’s result. Fix i > 0. L. Melkersson
and P. Schenzel [1993, Theorem 1] showed that

Assa Tor (M, I"/1"") and  Ass, Tor (M, A/I™)
are independent of n for all large n. By the same argument,
Assa Ext'y(M, I"/1"1)

The work for this paper was done while the author was visiting University of Kentucky by a fellowship
from Department of Science and Technology, India. The author is deeply grateful to DST for its
financial support and University of Kentucky for its hospitality.
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and, by [Katz and West 2004, 3.5],
Assa Ext'y(M, A/I")
are similarly independent of n. An example of A. Singh [2000] shows that
Assy liLn Exti‘(A/I”, M) need not be finite.
So in this example

U Assy Extf4 (A/I", M) is not even finite.

n>1

I state some questions in this area that motivated me. They were raised respectively
by W. Vasconcelos [1998, 3.5] and Melkersson and Schenzel [1993, page 936].

(1) Is the set |_J Asss Ext)y (M, A) finite?
i>0
2) Is the set U U Assy ToriA (M, A/I") finite?
i>0n=>0

The motivation for the main result of this paper came from (1). I do not believe
that the question has a positive answer in this generality, but I am unable to give
a counterexample. Note that if A is a Gorenstein local ring then Vasconcelos’s
question has, trivially, a positive answer. If we change the question a little then we
may ask: If M, D are two finitely generated A-modules,

is the set U Assy ExtiA (M, D) finite?

i>0

This is not known for Gorenstein rings in general. However, if A = Q/(f), where
f=fi,..., fc is aregular sequence, and if projdimQ M 1is finite, then the above
question has a positive answer. This can be seen by using the theory of cohomology
operators over such rings. This turns ;. ExtiA (M, D) into a finitely generated
module over Altq, ..., t.], where t; has dggree 2 for each i.

Using Melkerson and Schenzel’s question as a guidepost, I was interested to
solve the the following questions: Let (A, m) be a local complete intersection of
codimension c.

(a) Is the set U U Assy Ext"A (M, D/IjD) finite?
i>0 j>0
(b) Is the set | J | ] Assa Ext)y (M., I/D) finite?
i>0j>0

In Theorem 5.1 I prove that (b) holds. I have been unable to verify whether (a)
holds.
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Let R(I) = P, I"t" be the Rees algebra of /. The main result in this paper
concerns finite generation of a family of Ext modules:

Theorem 1.1. Let Q be a Noetherian ring with finite Krull dimension and let f =
f1, ... fc be aregular sequence in Q. Set A= Q/(f). Let M be a finitely generated
A-module with projdimy, M finite. Let I be an ideal in A and let N = D N, be a

finitely generated R(I)-module. Then n20
8(N) = P P Ext, (M. N,)
i=0 n>0
is a finitely generated bigraded ¥ = R(I)[t1, ..., t.]-module.

Remark 1.2. See Section 2.3 for a description of €(N) asa ¥ =R()[ty, ..., t:]-
module.

An easy consequence of this result is that (b) holds (by taking N =&, I" D);
see Theorem 5.2. A complete, local complete intersection ring is a quotient of a
regular local ring mod a regular sequence. So in this case (b) holds from Theorem 5.2.
The proof of (b) for local complete intersections in general is a little technical;
see Theorem 5.1. We also prove (b) for complete intersection rings which arise in
algebraic geometry; see Section 6.

We next discuss a surprising consequence of Theorem 1.1. Let (A, m) be a local
complete intersection of codimension c. Let M, N be two finitely generated A-
modules. Let u(X) denote the number of minimal generators of a finitely generated
A-module X. Define

lim
n—00 nb-1

cxa(M, N) =inf{b eN

— W(Exty(M, N)) }
—_— < 0.

In Section 7 we prove (see Theorem 7.1) that
@) cx4(M, I’N) is constant for all j > 0.

We now describe in brief the contents of this paper. In Section 2 we give a module
structure to €(N) over & (as in Theorem 1.1). We also discuss a few preliminaries.
The local case of Theorem 1.1 is proved in Section 3 while the global case is proved
in Section 4. In Section 5 we prove our results on asymptotic primes in the case of
local complete intersections. In Section 6 we prove our result on asymptotic primes
in complete intersection rings which arise in algebraic geometry. In Section 7 we
prove (7).

2. Module structure

Let Q be a Noetherian ring and let f = fi, ... f. be a regular sequence in Q.
Set A= Q/(f). Let M be a finitely generated A-module with projdim, M finite.
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We will not change M throughout our discussion. Let I be an ideal in A. Let

RU) = @nzo I" X" be the Rees algebra of I. We consider R(I) as a subring of

the polynomial ring A[X]. Let N = @ N, be a finitely generated % (/)-module.
Set nz0

E(N) = P @ Ext, (M., Ny).

i>0 n>0
In this section we show €(N) is a bigraded ¥ = R(I)[¢, ..., t.]-module. The
grading on ¥ is as follows: we setdegt; = (0,2) for j =1,...,c, and fora € I’

we set dega X® = (s, 0). We also discuss two preliminary results that we will need
later in this paper.

2.1. LetF:---F,— ---— F; — Fy— 0 be afree resolution of M as an A-module.
Lett,...t.: F(+2) — F be the Eisenbud operators; see [Eisenbud 1980, Sec-
tion 1]. Then:
(1) The t; are uniquely determined up to homotopy.
(2) Any two of them commute up to homotopy.

Let T = A[ty, ..., ] be a polynomial ring over A with variables ¢, ..., t. of
degree 2. Let D be an A-module. The operators ¢; give well-defined maps

tj: EthA(M, D) — Extiljz(M, D) forl<j<candalli,

which turn Ext}, (M, D) = ;- Exti‘ (M, D) into a module over 7. Furthermore,
these structures depend only on f, are natural in both module arguments and
commute with the connecting maps induced by short exact sequences.

2.2. Gulliksen [1974, 3.1] proved that if projdimQ M is finite then Ext}, (M, D)
is a finitely generated T-module. If A is local and D = k, the residue field of A,
Avramov [1989, 3.10] proved a converse; that is, if Ext’, (M, k) is a finitely generated
T-module then projdim, M is finite. For a more general result, see [Avramov et al.
1997, 4.2].

23. Let N = @nzo N, be a finitely generated module over R (/). Let a € I°.
Consider u = aX® € R(I);. The map

u
Nn e Nn+s

yields a commutative diagram

Hom(F, N,,) - Hom(F, N,))(+2)
J

] ]

Hom(F, Ny1s) ——= Hom(F, Ny4)(+2).
J
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Taking homology gives that €(N) = @ € Ext,, (M, N,) is a bigraded ¥-module,

where ¥ = R(D[t1, ..., t]. iz0n=0
Remark 2.4. (1) For each i, the R (/)-module & Ext’IA (M, N,) is finitely gener-
ated. nz0
(2) For each n, the A[t, . .., t.]-module Ext’;q (M, N,) is finitely generated.
i=0

2.5. Notation. (1) Let N = @ N, be a graded R(I)-module. Fix j > 0. Set

n>0
N=;=EP Na.

n>j

€(N> ;) is naturally isomorphic to the submodule

EN)=; =P Pew;

i>0 n>j
of €(N).
(2) If A — A’ is aring extension and if D is an A-module then set D' =D ®4 A’.

Notice that if D is a finitely generated A-module then D’ is a finitely generated
A’-module.

(3) Set ¥ =F ®4 A’. Notice that ¥’ is a finitely generated bigraded A’-algebra.
Let U =& P U, be a graded ¥-module. Then

i>0n>0
U=Ue,A=PHPUu,

i>0 n>0

is a graded ¥’-module.
We state two lemmas that will help us in proving Theorem 1.1.

Lemma 2.6. If €(N>;) is a finitely generated ¥-module then €(N) is a finitely
generated S-module.

Proof. Set D =% (N)/€(N>;). We have the following exact sequence of ¥-modules
0— é(N>;) — €(N)— D — 0.

Using Gulliksen’s result it follows that D is a finitely generated T = Az, ..., t.]-
module. Since T is a subring of &, we get that D is a finitely generated ¥-module.
Thus if €(N> ;) is a finitely generated -module then €(N) is a finitely generated
S-module ([

Lemma 2.7. (Keep the notation of 2.5(3).) Let A — A’ be a faithfully flat extension
of rings and let U = ;- D,=o Ui.n be a graded S-module. If U' is a finitely
generated ¥'-module then U is a finitely generated $-module.
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Proof. The set
D ={u;, ®1|u;, € Ui, where i, n > 0}

generates U’ as a ¥’-module. As U’ is a finitely generated ¥’-module, we can
choose a finite subset 6 of % which generates U’ as a ¥'-module. Let

V=u|lu®le%$).

Then V is a finitely generated submodule of U. Notice that U' = V’. Thus
(U/V)®a A" =0. Since A’ is a faithfully flat A-algebra we get U = V. So U is a
finitely generated ¥-module. ]

3. The local case

In this section we prove Theorem 1.1 when (Q, n) is local. Let m be the maximal
ideal of A. Set k = A/m. Let I be an ideal in A. Let

F(D=R) Q@4 k= @ I" jmI"
n>0

be the fiber cone of I.

3.1. Assume N = @ N, is a finitely generated R (7)-module. Notice that

n>0
F(N)=N®ak =D Na/mN,
n>0

is a finitely generated F'(/)-module. Define
spread(N) :=dimpg) N/mN.

Proof of Theorem 1.1 in the local case.

Case 1: The residue field k = A /m is infinite. We induct on spread(N). First assume
spread(N) = 0. This implies that N,/mN,, = 0 for all » > 0. By Nakayama’s
lemma, N, =0 for all n > 0; say N, =0 for all n > j. Then €(N>;) =0 and it
is obviously a finitely generated ¥-module. By Lemma 2.6 we get that €(N) is a
finitely generated ¥-module.

When spread(N) > 0 then there exists u = xt € R(/); which is (NG F (N))-
filter-regular, that is, there exists j such that

O: yu), =0 and (0: pyyu), =0 foralln > j.

Set N>j = N, and U = N ;/uN>;. We have an exact sequence of R([)-
modules nzj

0— N=;(—1) 5> N2j - U — 0.
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For each n > j the functor Homy4 (M, —) induces the long exact sequence of
A-modules

0 — Homu(M, N,,) = Homa(M, Ny1.1) — Homa(M, Uy41)
— Exty (M, N,) 5 Exti(M,N,11) — Ext\(M,U,.))

u

— Ext, (M, N,) = Ext'(M,N,11) — Exty(M,U,)
Using the naturality of Eisenbud operators we have the following exact sequence
of ¥-modules

B(N=j)(—1,0) L% g(N- j) — EU).

By construction,
spread(U) = spread(N> ;) — 1 = spread(N) — 1.

By the induction hypothesis, €(U) is a finitely generated ¥-module. Therefore by
Lemma 3.2 we get €(N>;) is a finitely generated ¥-module. Using Lemma 2.6 we
get that €(N) is a finitely generated ¥-module.

Case 2: The residue field k is finite.

In this case we do the standard trick. Let Q" = Q[X]up[x]- Set A’ = A®¢ Q'.
Notice that A’ = A[X]ma[x) is a flat A-algebra with residue field k(X) which is
infinite. Notice that fi, ..., f. is a Q'-regular sequence and Q'/(f) = A’. Set
I'=1A"and M'=M ®¢p Q"= M ®4 A’. Notice that projdim, M’ is finite. Set
R =R(I"), the Rees algebra of I’. Then N' = N ® 4 A’ is a finitely generated
R(I)'-module. Also note that €(N') =E(N) @4 A’.

By Case 1 we have that ¢(N’) is a finitely generated ¥’-module. So by Lemma 2.7
we get that €(NN) is a finitely generated ¥-module. U

The next lemma is a bigraded version of Lemma 2.8(1) of [Puthenpurakal 2005].

Lemma 3.2. Let R be a Noetherian ring (not necessarily local) and let B =
@i’ j=0 Bij be a finitely generated bigraded R-algebra with Bo,o = R. Note that B
need not be standard graded. Set

B, =@ Bo.)
Jj=0
Let V.= @ Vi j be a bigraded B-module satisfying these conditions:
i,j=0

(1) Foreachi >0, V; = @V, ; is finitely generated as a By-module.
Jj=0
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(2) There exists z € B0y (withr > 1) and a finitely generated bigraded B-module
D such that we have an exact sequence of B-modules

V(-r,0) 5> v 5 D,
Then V is a finitely generated B-module.

Proof. Step 1. We begin by reducing to the case when  is surjective. Notice that
D’ = image ¥ is a finitely generated bigraded B-module. If ¢': V — D’ is the
map induced by ¥ then we have an exact sequence

Vi—r0) S vS D o

Thus we may assume ¥ is surjective.

Step 2. Choosing generators:

2.1. Choose a finite set W in V of homogeneous elements such that

W) ={yw)|weW)}

is a generating set for D.
2.2. Assume all the elements in W have x-coordinate < c.

2.3. For each i > 0, by hypothesis, V; is a finitely generated B,-module. So we
may choose a finite set P; of homogeneous elements in V; which generates V;
as a By-module.

2.4. Set

c

szu(Ug)

i=0
Clearly G is a finite set.
Claim. G is a generating set for V.

Let U be the B-submodule of V generated by G. It suffices to prove that
Ui j =V, foralli, j > 0. By construction we have that for 0 <i <c¢

(*) Uij=V;; foreach j>D0.

We give X := Z-0 X Z>¢ the lex-order <, making it well ordered. So we can
prove our result by induction on X with respect to <.

The base case is (0, 0). In this case Ug o = Vo0 by (¥). Let (i, j) € X\ {(0, 0)}
and assume that for all (r, s) < (i, j) we have U,.; = V,..

Subcase 1: i <c. By (*) we have U; ; =V, ;.
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Subcase 2: i > c¢. Let p € V; ;. By construction, there exist wy, ..., w, € W C G
such that

V(p) = th//(wl), where h; € B.

=1

We may assume that deg h;w; = (i, j) for each [. Set p’ = Z hiw; € V; j. Then
p'eUjand p—p' ekery. So I=1

p—p =z-q, whereq € Vi, j).

If g =0then p = p’ € U; ;. Otherwise, note that (i —r, j) < (i, j). So by induction
hypothesis, g € U, j). It follows that p € U; ;. Thus V; ; CU; ;. Since U; ; C V; ;,
by construction it follows that U; ; = V; ;. The result follows by induction on X. [

4. The global case

We need quite a few preliminaries to prove the global case of Theorem 1.1. See
Section 4.2 for the difficulty in going from the local to the global case. Note
that in the local case we proved the result by inducting on spread(N). This is
unavailable to us in the global situation as there are usually infinitely many maximal
ideals in a global ring. Most of this section will discuss two invariants of a graded
R(I)-module N = P
by induction.

2>0 Nn- We will use these invariants to prove Theorem 1.1

4.1. Notation and conventions. We take the dimension of the zero-module to
be —1. We also set the degree of the zero-polynomial to be —1.

Let 33 € Spec Q. If P D f then set p =P/ f. If P D f then any A-module
localized at *j3 is zero. So assume B D f.

(D) Ry =RUAp) and Sy =R )plt1, ..., 1]
(2) My = My, has finite projective dimension as a Qqz-module.
(3) E(N)p =€(Ny).

4.2. The difficulty in going from local to global. For each p € Spec A it follows
from Section 4.1 that €(Ny) is a finitely generated ¥,-module. Usually Supp , €(N)
will be an infinite set. So we cannot apply the local case and conclude.

The situation when Supp 4 €(V) is a finite set will help in the base step of our
induction argument to prove Theorem 1.1. So we show it separately.

Lemma 4.3. If Supp, €(N) is a finite set then €(N) is a finitely generated ¥-
module.

Proof. We may choose a finite subset C of €(N) such that its image in €(N),
generates €(N), for each p € Supp, €(N). Set U to be the finitely generated
submodule of €(N) generated by C.
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Set D="¢(N)/U. Notice that D, = 0 for each p € Spec A. So D =0. Therefore
€(N) = U is a finitely generated ¥-module. U

4.4. Firstinductive device. Since N is a finitely generated R (/)-module we have
anng N, € anng N,y for all n > 0. Since A is Noetherian it follows that anng N,
is constant for all n > 0. Call this stable value £y. This enables us to define the
limit dimension of N.

limdimN = lim dimy N, =dim A/Ly.

n—oo

Since A has finite Krull dimension we get that limdim N is finite.
4.5. Let 3 be a prime ideal in A. If D is a finitely generated A-module then

anng,, Dy = (anny D) = (annyg D) Asp.
Therefore
(En)p = Ly

4.6. Note that if lim dim(N) = —1 then N; =0, say for all j > jo. So €(N>,) =0.
Using Lemma 2.6 it follows that €(/N) is a finitely generated ¥-module. The first
nontrivial case is the following:

Proposition 4.7. Iflimdim(N) = 0 then €(N) is a finitely generated S-module.

Proof. This implies that A/£y is Artinian. Say dim N, = 0 for n > r. Clearly,
Supp, €(N=) S Supp, A/ L,

a finite set of maximal ideals in A. It follows from Lemma 4.3 that €(N>,) is
a finitely generated ¥-module. Using Lemma 2.6 we get that €(/N) is a finitely
generated ¥-module. (]

4.8. Higher-degree filter-regular element. We do not have filter-regular elements
of degree 1 in the global situation. However we can do the following:

Set E = N/Hg+ (N). Assume E #0. As Hg+ (E) = 0 there exists homogeneous
u € R, such that u is E-regular [Bruns and Herzog 1993, 1.5.11]. Say degu =s.
Since E, = N, for all n > 0 it follows that the map N; — N;;; induced by
multiplication by u is injective for all i > 0. We will say that u is an N filter-regular
element of degree s.

4.9. The second inductive device. We now discuss a global invariant of N which
patches well with local ones.
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4.10. The local invariant. Let (A, m) be local and let W = @nzo W, be a finitely
generated R (/)-module. Suppose £y = anny W, for all n > c. Let a € £y be an
ideal. Fix j > 0. Set
0 if j <ec,
do(W,j)=10 if j >canddimW; <dimA/a,
e(m, W;) otherwise.
Note that for j > ¢, W; is an A/a-module. Furthermore d,(W, j) is the modified

multiplicity function on the A/a-module W;.

Remark 4.11. Notice if dim W; =dim A/a and j > c then
da(W, j) =dg, (W, j).
Let ;1(D) denote the minimal number of generators of an A-module D.

Lemma 4.12. The function d,(W, —) is of polynomial type of degree < u(I) — 1.

Proof. We may assume that the residue field of A is infinite. Set T =R (1) /aR(]) =
D,~o Tn- Notice Ty = A/a. Let x = xy, ..., x, be a minimal reduction of m(A/a).
So g(m, —) =e(x, —) [Bruns and Herzog 1993, 4.6.5]. By a result due to Serre
[Bruns and Herzog 1993, 4.7.6], we get that

e(x, Wj) = (=D'L(Hi(x, W))).
i=0
Notice H;(x, W) =& j>c H;(x, W;) is a finitely generated T'/x T-module. Notice
(T/xT)y=A/(a+x) is Artinian. Furthermore (7 /xT); is a quotient of R(); and
so can be generated by w(I) elements. Therefore the function j Z(Hi (x, Wj))
is of polynomial type of degree < () — 1. The result follows. ([

Definition 4.13. 6(a, W) is the degree of the polynomial function d, (W, —).

Remark 4.14. Clearly 6(a, W) is nonnegative if and only if limdim W =dim R/a
and is —1 otherwise. Note that if dim A/a =1limdim W then 8(a, W) =6 (Lw, W)
is independent of a.

4.15. The global invariant. Let A be a Noetherian ring with finite Krull dimension.

Let I = (x1,...,x5) beanidealin A. Let W = @nzo W, be a finitely generated

R(I)-module. We assume that £y = anny W,, for all n > c. Let a C £y be an ideal.
Set

€%(a) ={m | mem-Spec(A), m D aand dim(A/a)y =dim A/a}.
Let I = (xq,...,xy). If m € 6(a) we have:
(@ Wp= @nzo(Wn)m-



378 TONY J. PUTHENPURAKAL

®) Lw,, = (Lw)m- So am S Lw,,.

(©) O(am, W) <s—1.
Define

O(a, W) = max{0(ay, Wn) | m € €(a)}.

By (c) above we get that 6(a, W) is finite and is <s — 1.
4.16. Properties of 0(a, W). We describe some properties of 8(a, W) we need
for the proof of the global case of Theorem 1.1. Let I = (xy, ..., Xxy).
(1) 6(a, W) <s — 1. This is clear.

(i1) If £y # A then 0(Lyw, W) > 0. It suffices to consider the local case. Note that
then dg,, (W, j) > 0 for all j > c. It follows that 6(Lw, W) > 0.

>iii) 8(a, W) = —1 if and only if limdim W < dim A/a. If 8(a, W) = —1 then
0 (am, Win) = —1 for all m € €(a). This is equivalent to saying that lim dim W, <
dim(A/a)y, for all m € €(a). By definition of ¢(a) we have that

dimA/a=dim(A/a), foreachm € €(a).
Also note that as a C £y we have
limdim W = max{limdim Wy, | m € €(a)}.

Solimdim W < dim A/a.
Conversely if limdim W < dim A /a then for all m € €(a) we have

limdim Wy, <limdim W <dim A/a = dim(A/a)n.

So O(ay, Wy) = —1 for all m € €(a). Thus 6(a, W) = —1.

@iv) If 6(a, W) > 0 then 6(Lw, W) < 68(a, W). By (iii) we get that limdim W =
dim A/a. By hypothesis we also have a € £y . Since dim A/a = dim A/ Ly it fol-
lows that 6€(Lw) € €(a). Using Remark 4.11 it follows that 0 (Ly, W) < 0(a, W).

(v) Let u € R(I)+ be homogeneous of degree b. Assume u is W-filter regular and
W, £#0 forall n > 0. Set E = W/uW. Notice that £y C £g. Then

0 Lw, E)<6(Lw,W)—-1.

We have nothing to show if 8(Lw, E) = —1. So assume 9(Lw, E) > 0. Sup-
pose 0(Lw, E) =60((Lw)y, Ey) for some p € 6(Lw). Since u is W-filter-regular,
multiplication by u induces the exact sequence

0> W;_p—>W; > E; -0 forall j>>0.
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Localization at p yields an exact sequence
0— (Wip)p = (Wj), = (Ej)p — 0 forall j > 0.
Since dgwp (=, —) is an additive functor on (A/Ly)p-modules we get that

0((Cw)ps Eyp) =0((Cwhp, W) 1.
The result follows since
0((Cw)p, Ep) =0(Lw, E) and O((Lw)y, Wp) <O(Lw, W).

Proof of Theorem 1.1. We induct on limdim N. If imdim N = —1, O then the
result follows from Section 4.6 and Proposition 4.7.

Assume limdim N > 1 and assume the result holds for all R (/)-modules E with
limdim E <limdim N — 1. Let x € ®R(/)+ be homogeneous and an N-filter-regular
element. Let degx =r. Set D = N/xD. By Lemma 2.6 it suffices to assume the
case when x is N-regular.

We now induct on 6(L£y, N). If 0(Ly, N) = 0 then 6(Ly, D) < —1, by
Section 4.16(v). Using Section 4.16(iii) we get that

limdim D <dim A/£y =limdim N.

By the induction hypothesis (on lim dim) the module € (D) is a finitely generated
F-module. The short exact sequence of R(/)-modules

0—>N(—r)i>N—>D—>0
induces an exact sequence of ¥-modules
E(N)(—r,0) > €(N) — €(D).

By Lemma 3.2 we get that €(N) is a finitely generated ¥-module.

We assume the result if (£y, N) < i and prove it when 0(Lxy, N) =i + 1.
Let D be as above. So 6(£y, D) < i, by Section 4.16(v). If 6(£y, D) = —1 then
the argument as above yields €(N) to be a finitely generated ¥-module.

If 0(Ly, D) > 0 then by Section 4.16(iv) we get that 6(£p, D) <0(Ly, D) <i.
So by induction hypothesis on 6(—, —) we get that €(D) is a finitely generated
J-module. By an argument similar to the one above we get that €(N) is a finitely
generated -module. U

5. Application I: Asymptotic associated primes — the local case

In this section we give an answer to our main motivating question.

Theorem 5.1. Let (A, m) be a local complete intersection. Let M be a finitely
generated A-module. Let I be an ideal in A and let N = @@ N, be a finitely

n>0
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generated R(I)-module. Then

U U Assy Ext’A (M, Ny,) is a finite set.

n>0i>0

Furthermore there exist iy, ng such that for all i > iy and n > ng we have
Assa Extd (M, N,,) = Assp Ext3" (M, Ny,),
Assy Ex (M, N,) = Assg ExCT (M, N,y).

Recall a local ring A is said to be a complete intersection if A= Q/(f1s---s fo),
where (Q, n) is a complete regular local ring and f is a Q-regular sequence. If A
is a complete intersection and a quotient of a regular local ring T then it can be
shown that A =T/(g1, ..., &), where g is a T-regular sequence (see [Matsumura
1980, 21.2]). In this case Theorem 5.1 holds by the following more general result:

Theorem 5.2. Let Q be a Noetherian ring with finite Krull dimension and let f =
f1, ... fc be aregular sequence in Q. Set A= Q/(f). Let M be a finitely generated
A-module with projdimg, M finite. Let I be an ideal in A and let N = @B N, be a
finitely generated R(I)-module. Then nz0

U U Ass ExtiA (M, Ny,) is a finite set.

n>0i>0
Furthermore there exist iy, ng such that for all i > iy and n > ng we have
Assa Ext% (M, N,,) = Assy EXti(M, N,),
Assp ExHN (M, N,) = Assy Ext2T (M, N,,,).

The following example shows that two sets of stable values of associate primes
can occur.

Example 5.3. Let O =k[[u, x], A=Q/(ux). Let M=Q/(u), ] =A and N = M[¢]
(so N,, = M for all n).
For i > 1 one has (see [Avramov and Buchweitz 2000, 4.3])

Ex2 (M, M)=0 and ExtZ(M,M)=k.

5.4. We now state a special case of a result due to E. West [2004, 3.2 and 5.1].
Let R = A[xy, ..., x; y1,...Ys] be a bigraded A-algebra with degx; = (2, 0)
and degy; = (0, 1). Let M = € M; ») be a finitely generated R-module. Then:

i,n>0

(1) U U Assa M is a finite set.

i>0n>0

(2) There exist ig, ng such that for all i > iy and n > ny we have

Assg Miny = Assa Mig.ng),  ASSA Mit1,0) = Assg M(2ig+1,ng)-
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Proof of Theorem 5.2. The result follows from our main theorem (1.1) and 5.4. [
We need the following exercise problem from [Matsumura 1980, 6.7, page 42].
Fact 5.5. Let f: A — B be a ring homomorphism of Noetherian rings. Let U be a
finitely generated B-module. Then
AssaU={PNA|BecAssgU}.
In particular Assy U is a finite set.

There exist complete intersection rings which are not quotients of a regular
local ring (see [Heitmann and Jorgensen 2012]). So Theorem 5.2 does not settle
Theorem 5.1. To prove an analog of Theorem 5.2 for a local complete intersection
we need the following result.

Lemma 5.6. Let (A, m) be a Noetherian local rlng Let A be the completlon of A
with respect to m. Let B be a ﬁmtely generated A- algebra containing A. Let E
be an A-module such that E ® 4 A is a finitely generated B-module. Let D be any
A-module. Then:

(a) Ass; E®a A is a finite set.
(b) Assa D= {PNA|PeAss;(D®4A)).
(c) Assy E is a finite set.

To prove this result we need Theorem 23.3 from [Matsumura 1980]. Unfortu-
nately, there is a typographical error there, so we state it here.

Theorem 5.7. Let ¢: A — B be a homomorphism of Noetherian rings, and let E
be an A-module and G a B-module. Suppose that G is flat over A; then we have
the following:

(1) Ifp € Spec A and G /pG # O then
“o(Assg(G/pG)) = Assa(G/pG) = {p}.

(i) Assp(E®4G)= | ] Assp(G/pG).
peAssa(E)

Remark 5.8. In [Matsumura 1980], Ass4 (E®G) is written instead of Assg(ERG).
Also note that “p(*3) =*P N A for P € Spec B.

Proof of Lemma 5.6. We consider the natural ring homomorphisms
o A<—>A, B: A< B.

(a) We use the map 8 and Fact 5.5 to get our result.
(b) Set X ={PNA [P € Ass;(D®a A)}. We consider the flat map «.
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Let g € X. Say q=PNA, where P € AssA D®A. By Theorem 5.7(ii),
B € Ass; A/pA for some p € Ass4 D. Notice A/pA # 0. By Theorem 5.7.(i) it
follows that p =8N A =q. So X C Assy D.

Conversely, if p € Assy D, then by Theorem 5.7(ii), Ass ; A/pA CAss; D® A.
Notice A/pA # 0. Let P € Ass; A/pA Then by Theorem 5.7(i) we have p =
PBNAeX. Thus Assg D C X. It follows that Assy D = X.

(c) This follows from (a) and (b). O

Proof of Theorem 5.1. We consider the flat extension «: A — A. Say A= /().
where (Q, n) is a regular local ring and f = f1, ..., f. € n? is a regular sequence.

(1) Consider ¢(N) = ;.o @B, Ext'y (M, N,,) as an A-module. By Theorem 1.1,
€(N) ® A is a finitely generated B = R(I A)[t1, .. .t.]-algebra. By Lemma 5.6 we
get that Ass4 €(N) is a finite set. Notice that

Assy €(N) = |_J | Asss Exty, (M, N,).

n>0i>0

(2) Set € = €(N). By Theorem 1.1 there exist iy and ng such that for all i > iy and
n > ng we have

Ass ;€20 ® A= ASS ; €2ig.ng @ A, AsS ;€210 ® A= ASS 7 €2ig11,ng ® A.
By Lemma 5.6(b) it follows that for all i > iy and n > ny we have

Assp €in = ASSA €2igng,  ASSA €210 = ASSA €2t 1 - O

6. Application II: Asymptotic associated primes — the geometric case

Let V be an affine or projective variety over an algebraically closed field K. Then V
is said to be a local complete intersection if all of its local rings are complete
intersections. Let A be the coordinate ring of V. In the affine case we have A, is
a complete intersection for all p € Spec(A). In the projective case we have Ay,
is a complete intersection for every p € Proj(A). In this section we prove results
analogous to Theorem 5.1 to coordinate rings of locally complete intersection
varieties.

We first consider the affine case. In this case we prove the following general result.
Recall a ring R is regular (a complete intersection) if Ry, is regular (a complete
intersection) for all p € Spec(R).

Theorem 6.1. Let Q be a regular ring of finite Krull dimension and let a be an ideal
in Q with A= Q/a a complete intersection. Let M be a finitely generated A-module
and let I be an ideal in A. Let N = @ N, be a finitely generated R(I)-module.

n>0
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Then
U U Ass Ext’A (M, Ny,) is a finite set.

n>0i>0

Furthermore there exist iy, ng such that for all i > iy and n > ng we have

Assy Extff (M, N,) = Assx Extijo (M, Ny,),
Assy Exti"Jr1 (M, N,) = Assz EXtijOH(M, Nuy)-

6.2. Before proving Theorem 6.1 we state the analogous result in the projective
case. Let a be a graded ideal in Q = K[Xo, X1, ..., X,»], where deg X; =1 for all
i. Here K is not necessarily algebraically closed. Set A = Q/a. We assume A )
is a complete intersection for every p € Proj A. Recall that if U is the set of
homogeneous elements in A \ p then A, is the degree-zero part of the graded
ring U7'A.

Let m be the unique maximal homogeneous ideal of A. If E is a graded A-module
then note that all its associate primes are homogeneous prime ideals of A. Set

*Assa(E) = Assa(E) \ {m},
the relevant associate primes of E. In the projective case our main theorem is this:

Theorem 6.3. (Keep the hypotheses of Section 6.2; note that R(/) is a bigraded
ring.) Let M be a finitely generated graded A-module and let I be a homogeneous
ideal in A. Let N = @,y N, be a finitely generated bigraded R(I)-module (so
each Ny, is a graded A-mzdule). Then

U U *Ass Ext’g (M, N,) is a finite set.

n>0i>0

Furthermore there exist iy, ng such that for all i > iy and n > ng we have

*Assa Ext3 (M, N,) = *Ass s EXC* (M, N,,,),
*Ass 4 Exti’]rl (M, N,) = *Assy4 Exti‘iOH(M, Nyy).

We now prove Theorems 6.1 and 6.3. We begin with the affine case. We need
the following:

Lemma 6.4. Suppose A = Q/a, where Q is a regular ring. Suppose for some
p € Spec A the ring Ay is a complete intersection. Let q € Spec Q with q/a = p.
Then there exist g € Q \ q such that aQ, is generated by a Q ,-regular sequence.
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Proof. We have Ay, = Q4/aQq. Since A, is a complete intersection it follows
from [Matsumura 1980, 21.2] that aQ, is generated by a regular sequence, say

fi, ..., fo. We may assume f; € a for all i.
Set
a (f],...,f,'_1)2fi .
EFE=——— and D;= fori=1,...,c.
(fl’---’fc) (f]v"'vﬁ—l)
Let

L:E@(@Di).

Then L is a finitely generated Q-module and L, = 0. So there exists g € O\ q such

that Ly =0. In Qg note that aQy = (f1, ..., fc) Q. Alsoas (fi, ..., fo)Qq# Q4
we have that (f1,..., fo)Qg # Q. Since (D;), =0fori =1, ..., c we get that
f1, ..., fe1s a Q,-regular sequence. U

Proof of Theorem 6.1. Let p € Spec A. Then A, is a complete intersection. Let
q € Spec Q with q/a = p. Then by Lemma 6.4 there exist g € Q \ q such that aQ,
is generated by a Q-regular sequence. Let g, be the image of g in A.

For x € A let D(x) = {3 € Spec A | x ¢ 3}. Then D(x) is a basic open set in
Spec(A). Note that p € D(gp). Clearly

Spec A = U D(gp).
peSpec A
As Spec A is quasicompact we have
Spec A = D(gp,)U---UD(gp,) forsomem > 1.

Set g; = gp,. Note that for any A-module E we have

m
Assy E = U (Assa, Eg)NA,
i=1
and that €(N)g = €(N,). Thus it suffices to prove the result for A, for each i.
Foreachi =1,..., m we have that

A — Q; aregular ring of finite Krull dimension
& regular sequence in Q; ’

As Q; 1s aregular ring of finite Krull dimension we get that projdim, My, is finite.
So we can apply Theorem 5.2 to get the result. O

To prove Theorem 6.3 we need a few preliminaries. Recall that a Z-graded ring
S =@,y Su is said to be *-local if it has a unique proper maximal homogeneous
ideal 3. Note that 3 is a prime ideal in S but not necessarily a maximal ideal in S.
The functor — &) Sy from the category of graded S-modules to the category of
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Sy-modules is faithfully exact, by [Bruns and Herzog 1993, 1.5.15]. The following
result is well known and can be easily proved using the same reference.

Lemma 6.5. Let S = P, .
maximal homogeneous ideal *B. Let a be a homogeneous ideal in S. If ay is
generated by a regular sequence then a is generated by a regular sequence of
homogeneous elements. Furthermore if € = {x, | o € A} is a generating set of a
consisting of homogeneous elements then we may choose x = xi, ..., x. € € with
a = (x) and x is an S-regular sequence.

7 Sn be a x-local Cohen—Macaulay ring with unique

To prove Theorem 6.3 we need the following analogue of Lemma 6.4.

Lemma 6.6. Suppose A= Q/a, where Q=K|[Xo, ..., X,]is graded withdeg X; =
1 for all i and a is a homogeneous ideal in Q. Suppose for some p € Proj A the
ring A is a complete intersection. Let q € Proj Q with q/a = p. Then there exist
homogeneous g € Q \ q such that aQ is generated by a Qq-regular sequence.

Proof. Set
U = {h € A | h homogeneous and % ¢ p},

W ={h € Q| h homogeneous and & ¢ q}.
Then U~'A = W~'Q/W~'a. Also note that some X; ¢ q. It follows that
UTTAZ Aglt,t™"] and W'Q = Qlt, 7.
Claim. U~'A is a complete intersection.

To see this, first observe that as Qy is a localization of W~'Q we have a flat
map Q) — Qg of local rings. As Qg is regular we have that Q) is regular
(see [Matsumura 1980, 23.7]). Notice that A, is a quotient of a regular local
ring Q(q). So by [Bruns and Herzog 1993, 2.3.6], we have that A ,)[] is a complete
intersection. As U ™! A is a localization of Ay [t], it is also a complete intersection.

By Lemma 6.5 we have that W~!a is generated by a regular sequence x =
X1, ..., Xc with x € a homogeneous. Set

E — fori=1,...,c.

a and D= Koo Xio1)? X
- ;=
17--" C 1""7 i—]
(x Xc) (x Xi_1)

L:EEB(IGL?D,).

We have WL =0. Also, L is a finitely generated Q-module. So there exist g € W
with L, =0. In Q, note that aQg = (x1, ..., x.) Q. Also, as (x1, ..., x)W1 0 #
W~10 we have that (xi, ey X)) Qg # Qg. Since (D;j)g =0fori=1,...,c we
get that xy, ..., x. i1s a Qg-regular sequence. (]

Set
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The proof of Theorem 6.3 is similar to that of Theorem 6.1, so we just sketch it.

Sketch of proof of Theorem 6.3. We use Lemma 6.6 and an argument analogous to
the one used Theorem 6.1 to obtain

ProjA ="D(g;)U---U*D(g,) forsomer >1,

for some homogeneous g; € A and Ag, = Q;/a;, where Q; is regular of finite Krull
dimension and a; is generated by a regular sequence. Note that for x homogeneous,

*D(x) = {F €Proj A | x ¢ P}
Let E be a graded A-module. Note that

P
*Assy E = U (Assa, Eg)NA.
i=1
The result now follows by applying Theorem 5.2 to each Ag, = Q;/a;. O
7. Application III: Support varieties

Let (A, m) be a local complete intersection of codimension c. Let M, N be two
finitely generated A-modules. Define

A b1

cxa(M,N) = 1nf{b eN

o HEXG (M. N)) <oo}

In this section we prove the following theorem:

Theorem 7.1. Let (A, m) be a local complete intersection, M, N two finitely gen-
erated A-modules and let I be a proper ideal in A. Then

cxa(M, I’N) is constant for all j > 0.

7.2. Reduction to the case when A is complete and the residue field of A is
algebraically closed.

7.3. Suppose A’ is a flat local extension of A such that m’ = mA’ is the maximal
ideal of A’. If E is an A-module then set E/ = E ®4 A’. Notice that I’ = [A’;
we consider it as an ideal in A’. By [Avramov 1998, 7.4.3], A’ is also a complete
intersection. It can be easily checked that

cxa (M, (I Ny =cxs(M, I'N) forall n>0.

We now do our reduction in two steps.

By [Bourbaki 1983, Chapitre 9, appendlce corollaire du théoréme 1, p. IX.41],
there exists a flat local extension A € A such that fii = mA is the maximal ideal
of A and the residue field k of A is an algebraically closed extension of k. By
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Section 7.3 it follows that we may assume k to be algebraically closed. We now
complete A. Note that A is a flat extension of A which satisfies Section 7.3.
Thus we may assume that our local complete intersection A

(1) is complete. So A = Q/(fi1,..., fc), where (Q,n) is regular local and
fis ..., f. € n?is a regular sequence.

(2) has an algebraically closed residue field k.

Of course there exist many Q and f1, ..., f. of the type as indicated above. We
simply fix one such representation of A.

7.4. Let U, V be two finitely generated A-modules.

Let Ext*(U, V) = @,-( Ext, (U, V) be the total ext module of U and V. We
consider it as a (finitely g_enerated) module over the ring of cohomological oper-
ators Alr, ..., t.]. Since projdimg, U is finite Ext*(U, V) is a finitely generated
Alty, ..., t.]-module.

7.5. Let C(U,V) = Ext*(U, V) ®4 k. Clearly C(U, V) is a finitely generated
T =klty, ..., t.]-module. (Here the degree of #; is 2 foreachi =1, ..., c). Set

a(U, V) =anny C(U, V).
Notice that a(U, V) is a homogeneous ideal.
7.6. We now forget the grading of T and consider the affine space A€ (k). Let
VU, V)=V(aU, V)) € A(k).
Since a(U, V) is a graded ideal we get that V'(U, V) is a cone.
7.7. By [Avramov and Buchweitz 2000, 2.4] we get that
dimV (U, V) =cxa(M, N).

Lemma 7.8. If I is an ideal in A then there exists jy > 0 such that

VU, I'V)=YU,1°V) forall j> jo.

Proof of Theorem 7.1 assuming the lemma. By 7.3 we may assume that A is
complete and has an algebraically closed residue field. The result now follows from
7.7 and Lemma 7.8. (]

79. Let N =@, .0 ["V. Set €(N) = D, -0 D,~¢ Ext (U, I"V). Set C(N) =
E(N) ®a k. By Theorem 1.1, ¢(N) is a ﬁni_tely g_enerated =R, ...,t]-
module. It follows that C(N) is a finitely generated, bigraded, G = F(I)[t, .. ., t.]-
module. Recall that F(I), the fiber cone of I, is a finitely generated k-algebra.
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So we may as well consider C(N) as a bigraded R = k[ X1, ..., X\, 11, ... tc]-
module (of course here X1, ..., X,, are variables). Furthermore deg X; = (1, 0) for
[=1,...manddegt; =(0,2) fors=1,...,c. Set T =k[t1, ..., 1]

7.10. Advantages of coarsening the grading on C(N). By forgetting the degree
on the #; we may consider R = T[X1, ..., X,,]. Notice that

C(N) = ED CWU, I'V)

n>0
as a graded R-module.

Proof of Lemma 7.8. We make the constructions as in Section 7.10. So C(N) is a
finitely generated graded R =T[X1, ..., X,,]-module. Notice that R is N-standard
graded. So there exists jy such that

anny C(N); = anny C(N)j, forall j >0.
The results follows. U
Question 7.11 (With hypotheses as in Theorem 7.1).

Is cxo(M, N /I’ N) constant for all j > 0?
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INDEX FORMULAE FOR STARK UNITS AND THEIR
SOLUTIONS

XAVIER-FRANCOIS ROBLOT

Let K/ k be an abelian extension of number fields with a distinguished place
of k that splits totally in K. In that situation, the abelian rank-one Stark
conjecture predicts the existence of a unit in K, called the Stark unit, con-
structed from the values of the L-functions attached to the extension. In
this paper, assuming the Stark unit exists, we prove index formulae for it.
In a second part, we study the solutions of the index formulae and prove
that they admit solutions unconditionally for quadratic, quartic and sextic
(with some additional conditions) cyclic extensions. As a result we deduce a
weak version of the conjecture (“up to absolute values”) in these cases and
precise results on when the Stark unit, if it exists, is a square.

1. Introduction

Let K /k be an abelian extension of number fields. Denote by G its Galois group.
Let So and S;am denote respectively the set of infinite places of k and the set of
finite places of k ramified in K/k. Let S(K/k) := Soo U Stam- Fix a finite set S
of places of k containing S(K /k) and of cardinality at least 2. Assume that there
exists at least one place in S, say v, that splits totally in K /k and fix a place w of
K dividing v. Let e be the order of the group of roots of unity in K. In this setting
Stark [1980] made the following conjecture.

Conjecture (abelian rank-one Stark conjecture). There exists an S-unit ek /4 s in
K such that

(1) For all characters x of G,

1
Lipes©, 00 == x(@) loglek i s,
geG
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where Lg /i s(s, x) denotes the L-function associated to x with Euler factors
at prime ideals in S deleted.

(2) The extension K (¢ I](//ek’ ¢)/ k is abelian.
(3) If furthermore |S| > 3 then ¢ is a unit of K.

The unit ek /4 s is called the Stark unit associated to the extension K/ k, the set
of places S and the place v.! It is unique up to multiplication by a root of unity in
K. A good reference for this conjecture is [Tate 1984, Chap. IV].

The starting point of this research is the conjectural method used in [Cohen and
Roblot 2000; Roblot 2000] (and inspired by [Stark 1977]) to construct totally real
abelian extensions of totally real fields. Let L/k be such an extension. The idea is
to construct a quadratic extension K /L, abelian over k, satisfying some additional
conditions similar to the assumptions (A1), (A2) and (A3) below. Assuming the
Stark conjecture for K /k, S(K /k) and a fixed real place v of k, one can prove that
K =k(¢)and L =k(), where o :=e+¢ ' and e := €K /k,S(K k) 18 the corresponding
Stark unit. Using part (1) of the conjecture, one computes the minimal polynomial
A(X) of « over k. The final step is to check unconditionally that the polynomial
A(X) does indeed define the extension L.

One notices in that setting that the rank of the units of K is equal to the rank of
units of L plus the rank of the module generated by the Stark unit and its conjugates
over k. A natural question to ask is whether the index of the group generated by the
units of L and the conjugates of the Stark unit has finite index inside the group of
units of K and, if so, if this index can be computed. A positive answer to the first
question is given by Stark in [1976, Theorem 1]. In [Arakawa 1985], Arakawa gives
a formula for this index when k is a quadratic field. Using similar methods, we
obtain a general result (Theorem 2.2) in the next section. Then we derive a “relative”
index formula (Theorem 2.3) that relates the index of the subgroup generated over
Z[G] by the Stark unit inside the “minus-part” of the group of units of K to the
cardinality of the “minus-part” of the class group of K.? In the third section, we
use results of Rubin [1992] on a form of the Gras conjecture for Stark units to show
that the relative index formula implies local relative index formulae (Theorem 3.2).
Starting with the fourth section, we stop assuming the abelian rank-one Stark
conjecture and study directly the solutions to the index formulae. In section 4, we
look at how much these index formulae characterize the Stark unit (Proposition 4.1
and Corollary 4.5). In the next section, we introduce the algebraic tools that will be
needed to prove the existence of solutions in some cases in the following sections.
We also reprove in that section the abelian rank-one Stark conjecture for quadratic

IIn fact the place w but changing the place w just amounts to replace the Stark unit by one of its
conjugate.
2Similar in some way to the index formulae for cyclotomic units; see [Washington 1997, Chap. 8].
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extensions (Theorem 5.5). Finally, sections 6 and 7 are devoted to a proof that
solutions to the index formulae always exist for quartic extensions (Theorem 6.1)
and sextic extensions (Theorem 7.1) with some additional conditions in that case.
We show that the existence of solutions in those cases imply a weak version of the
conjecture, where part (1) is satisfied only up to absolute values.> We also obtain
results on when the Stark unit, if it exists, is a square (Corollary 2.4, Theorem 5.5,
Corollary 6.2 and Corollary 7.2).

2. The index formulae

We assume from now on that the place v is infinite* and that & has at least two
infinite places. Therefore we can always apply the conjecture for any finite set S
containing S(K/k). The cases that we are excluding are kK = Q0 and k a complex
quadratic field. In both cases the conjecture is proved and the Stark unit is strongly
related to cyclotomic units and elliptic units respectively.

Fix a finite set S of places of k containing S(K/k). We make the following
additional assumptions.

(A1) k is totally real and the infinite places of K above v are real, the infinite
places of K not above v are complex.

(A2) The maximal totally real subfield KT of K satisfies [K : K*] = 2.

(A3) All the finite primes in S are either ramified or inertin K /K.

If S contains more than one place that splits totally in K /k then the conjecture
is trivially true with the Stark unit being equal to 1. Therefore the only non trivial
case excluded by (A1) is the case when k has exactly one complex place and K is
totally complex. It is likely that most of the methods and results in this paper can
be adapted to cover also that case. Assumptions (A2) and (A3) are necessary to
ensure that the rank of the group generated by the units of K+ and the conjugate
of the Stark unit has finite index inside the group of units of K. Without these
assumptions, global index formulae for Stark units as they are stated in this article
cannot exist although it is still possible to prove index formulae for some p-adic
characters if one takes also into account Stark units coming from subextensions
(see [Rubin 1992] or Section 3).

3Unfortunately, in most cases the values are complex and there does not appear to be any obvious
way to remove these absolute values.

4For v a finite place, the abelian rank-one Stark conjecture is basically equivalent to the Brumer—
Stark conjecture; see [Tate 1984, §IV.6]. Recent results of Greither and Popescu [Greither and Popescu
2011] imply the validity of the Brumer—Stark conjecture away from its 2-part and under the hypothesis
that an appropriate Iwasawa p-invariant vanishes.
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We assume until further notice that the conjecture is true for the extension K / k, the

set of places S and the distinguished place v.

Denote by ¢ := g/« s the corresponding Stark unit. From now on, all subfields
of K (including K itself) are identified with their image in R by w. We make the
Stark unit unique by imposing that ¢ > 0. It follows that £ > 0 for all g € G; see
[Tate 1984, §IV.3.7]. One can also prove under these hypothesis — see [Roblot
2000, Lemma 2.8] —that |S(K/k)| > 3 and therefore ¢ is a unit of K by part (3)
of the Conjecture, and that ||, = 1 for any place w’ of K not above v.

Let m be the degree of K /k and d be the degree of k/Q. Thus we have
[K :k]=2m and [K : Q] =2md. Let T denote the non trivial element of Gal(K /K ).
It is the complex conjugation of the extension K and, by the above remark, we
have e = &~!. Let G* denote the Galois group of K*/k, thus G* = G/(t). It
follows from (A1) that the signatures of KT and K are respectively (dm, 0) and
(2m, m(d — 1)). Therefore the rank of Ug+ and Uk, the group of units of K and
K, are respectively dm —1 and 2m+m(d — 1) — 1 = (dm — 1) +m. Let Usk be the
multiplicative Z[ G ]-module generated by +1, ¢ and Ug+. Let R:={p1, ..., p} be

a fixed set of representatives of G modulo (7). Set gy := p[l(s) fore=1,...,m.
Since t(¢) = ¢!, the group Usgek is generated over Z by {£1, 11, ..., Nam—1,
€1, ..., &m}, Where 01, ..., Nam—1 is a system of fundamental units of K*. Let

[-1;, 1 < j < (d+ 1)m denote the infinite normalized absolute values of K ordered
in the following way. The 2m real absolute values of K, corresponding to the
places over v, are | - |; := [p;(-)] and | - |j 4 := |pjT(-)| for 1 < j < m. The
complex absolute values, corresponding to the infinite places not above v, are | - |;
for 2m + 1 < j < (d + 1)m. The regulator of Us, is the absolute value of the
determinant of the matrix of size (d + 1)m — 1 whose j-th row has entries

log nl;, logInalj, ..., lognam—1l;, logletl;, ..., logleul;.

(We discard the last absolute value, | - [(g4+1)m.) For 1 < j < (d + Dm, let | - |;.r
denote the restriction of the absolute value |- |; to K *. For 1 < j < m, the places
corresponding to | - |; and | - |;T are real and log |17,~|;r =log|n:|; = log ;| j4+m. For
2m+1 < j < (d + 1)m, the places corresponding to |- |; and |- |;.r are respectively
complex and real, thus log |17,-|;.r = 2log [n;|;. Note also that |g¢| 1, = |8(|,;1 for
1 <j<mand|g|;=1for2m+1<=< j < (d+ 1)m. Therefore the matrix is equal
to

log [n:|] | loglecl;

10g|;7i|;r —log |e¢l; ,
I+

210g [ni |j/ 0 3, j",(,0)

3Since v is the only real place of k that stays real in K, we will usually not specify it.
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where 1 < j<m,2m+1<j<d+1m—-1,1<i<dm—1land1 <{<m.
Now we add the j-th row to the (m + j)-th row for 1 < j <m and we obtain finally
the following matrix with the same determinant

log |n;} |log leel,
2lognilT| 0
O+

2log |mil (o ):.0)
Therefore the regulator of Usg,k is
(2.1 Reg(Usark) = |det(log |e¢l;) ¢ det(21log |77i|7/)j/,i|,
where 1 < £, j <m, 1 <i <dm— 1 and j' runs through the set {1, ..., m,2m +
I,..., (d+1)m—1}. The absolute values |-, ..., |- %, | [3,pps - [ I 1mer

are the absolute values corresponding to all the infinite places of K™ but one. Thus
the second term is 29"~ R +. For the first term, we have

|det(log [e¢,) .| = |det(log |6”* " ) ser].

We say that a character y of G is even if y(tr) = 1, otherwise x is odd and
x (1) = —1. The even characters of G are the inflations of characters of G*. We
have the following modification of the classical determinant group factorization.

Lemma 2.1. Let a, € C, for g € G, be such that a, = —ag for all g € G. Then

det(ap-)paer= || D x(p)ay.

x odd peR

Proof. Let E be the C-vector space of functions f : G — C such that f(rg)=—f(g)
for all g € G. Clearly it has dimension m and admits (), oda has a basis. Another
basis is given by the functions (8,) e defined by

3p(p) =1, 8,(tp) =—1and §,(g) =0 for all g € G with g # p, 7p.

The group G actson E by f° : g+ f(go) for f € E and o € G. In particular, we
have f* = — f. We extend this action linearly to give E a structure of C[G]-module.
Now consider the endomorphism defined by

T := Z agg.

geG
We have

T(p) = Z agdy + Z agdy = Z agdpg-1 — Z Agrpg-1-

geG geCG geG geG
pg~'eR pg ' &R pg'EeR pg ' &R
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1 1

We write A = pg~ " in the first sum and A = tpg ™" in the second one. We get

TGp) =) ap-18— Y 18 =2 a,-15;.

LER LER LER

Therefore the determinant of T is 2" det(a,-1),..cr- On the other hand, for
odd, we compute

T() =) agx®=) azx(2x.

geG geG

Thus x is an eigenvector for 7 with eigenvalue deG agx(g) =2 ZpeR x(Pap.

Therefore det(7) =2" [] Y. x(p)a, and the result follows. O
x odd peR

By the lemma, we get

-1 1
(22) detllogle™ Dpner =[] 3 x(logle’t= [T 5D x(e)logle?]

x odd peR xodd geG

= [T Lx/x.50. 0,
x odd
using part (1) for the last equality and the fact that the number of roots of unity in
K is 2 since K is not totally complex by (A1). On the other hand, we have

s,k (s)

2.3 L » X) = )
(2.3) TT Lxsests. ) e )

x odd

where gk (s) := {54k (s) and {5 g+(s) := s, x+(s) denote respectively the
Dedekind zeta functions of K and K with the Euler factors at primes in S and
Sk+ removed. Here Sk and Sg+ denote respectively the set of places of K and of
K™ above the places in S. We will often use by abuse the subscript S instead of
Sk or Sg+ to simplify the notation. Taking the limit when s — 0 in (2.3) and using
the expression for the Taylor development at s = 0 of Dedekind zeta functions —
see [Tate 1984, Corollary 1.1.2] — we get

hg Rk
T pt’
hyx R

(2.4) [T Lx/ks0. ) =2%
x odd

where tg is the number of prime ideals in Sg+ that are inert in K/K* and hg,
Rg, hg+ and R+ are respectively the class numbers and regulators of K and K.
Putting together equations (2.1), (2.2) and (2.4), we get the following result.

Theorem 2.2. The index of Ustk in the group of units of K is
Uk : Usiar) = 257" h [y,

where tg is the number of prime ideals in Sk+ that are inert in K/K™. (]
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Let Clg and Clg+ denote respectively the class groups of K and K. Define
Cly and Uy as the kernel of the following maps induced by the norm N :=1+1
of the extension K /K™

Cly :=Ker(N:Clg — Clg+) and Uy :=Ker(N: Uk — Ug+),

where Ug and Ug+ are respectively Ug /{=£1} and Uk~ /{=£1}. From now on, we
use the additive notation to denote the action of Z[G], and other group rings, on Ug
and its subgroups U, Uk+, . ... For x € U, we denote by ¥ its class in Ug and
adopt the following convention: if X € U, we let x denote the unique element in
the class x such that x > 0. Note that N'(x) = N(—x) = 1 since K/K ™ is ramified
at least one real place.

Theorem 2.3. We have
(Ug 1 ZIG]- &) =2°75|Clg|,
where 2¢ = (Ug+ : N(Ug)).

Proof. By class field theory the map N : Clxg — Clg+ is surjective. Therefore
|Cly| = hg/hg+. On the other hand, if we let Usgark := Uspark/{E1}, we have

Ker (N : Usiark = Ug+) =Z[G]-& and Im (N : Usark = Ug+) =2 Ug+.
Therefore we get
(Uk : Usark) = N(Ug) : 2 Ug+) (Ug : Z[G] - ).
Since (U j UStaIk) = (Uk : Ustark), it follows from Theorem 2.2 that

2t5+dm71 |C1% |
(N(Uk):2-Ug+)’

(Ug :ZIG]-&) =

We conclude by noting that

- - (l_][(+ 12 UK+) pdm—1
NOg): 2 Ug+) = += K — O
WUx):2-Ug:) (Ok+ - N(Ox)) ~ (Og+: N(Tx))

It has been observed that the Stark unit is quite often a square. The theorem
provides us with a necessary condition for that to happen.

Corollary 2.4. Let c be the 2-valuation of the order of Cl. A necessary condition
for the Stark unit ¢ to be a square in K is

et+its+c=m.

Proof. Assume that ¢ = n? with n € K. Then it is easy to see that 1 € Ug and
therefore (Z[G] -n:Z7[G] -é) = 2" divides 26+IS|C1I_(|. O
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We will see in (5.10) that ¢ > (d — 1)m — 2. Therefore the inequality in the
corollary is always satisfied for d > 2 +2/m. However, this is not enough to ensure
that the Stark unit is a square in general. Indeed at the end of the paper we give
an example of a cyclic sextic extension K /k satisfying (A1), (A2) and (A3), and
with k a totally real cubic field where the Stark unit, assuming it exists, is not a
square even though e > m. But, in all the cases that we study, we can prove that
for d sufficiently large the Stark unit is always a square. Of course these cases are
quite specific and it is difficult to draw from them general conclusions, but still we
are lead to ask the following question.

Question. Fix a relative degree m. Does there exist a constant D (m), depending
only on m, such that for any extensions K /k of degree 2m and any finite set of
places S containing S(K/k) satisfying (A1), (A2) and (A3), and with d > D(m),
the corresponding Stark unit, assuming that it exists, is always a square in K?

It follows from the result of the next sections that the answer is positive for
1 <m <3 and that D(1) = D(3) =4 and D(2) =3.

3. Rubin’s index formula

In [Rubin 1992], Rubin proves Gras conjecture type results for Stark units using
Euler systems. His results are generalized by Popescu [2004]. In this section, we
use the results of Rubin to get a similar result in our setting. To be able to use
Rubin’s results we need to make the following additional assumption:

(A4) K contains the Hilbert Class Field H of k.

We assume in this section that the conjecture is true for the extensions and set of
places as described in [Rubin 1992].

We first introduce the results of Rubin. Let § be the conductor of K /k. For any
modulus g dividing f, let Ky = K Nk(g) be the intersection of K with the ray class
field of k of conductor g. Since v is totally splitin K/ k, one can apply the conjecture
to the extension K/ k, the set of places S(Ky/k) and the place v, and get a Stark
unit that we denote by &4. Let G4 be the Galois group of K/k. Note that by (A1)
the group of roots of unity in K is {#=1}. Part (2) of the conjecture is equivalent to
the fact that &5 e U,Z(B for all g € Gg; see [Tate 1984, Proposition IV.1.2]. Define
Rstark as the following Z[G]-module:

Rstark = (&1, (€571)"/? for g | f and g € Gg)z(6)-

Let p be a prime number that does not divide the order of G. In particular, p is an
odd prime. Denote by G, the set of irreducible Z,-characters of G. For ¢ € G,
and M a Z[G]-module, we set

MY := M ®z161Z,[¥],
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where Z,[y] is the ring generated over Z,, by the values of ¥/ and G acts on Z ,[/]
via the character . The following result is a direct consequence of Theorem 4.6
of [Rubin 1992].

Theorem 3.1 (Rubin). Ify € G p is odd then

|k /Rsan)” | =1k |
From this we deduce an analogous statement for our case.

Theorem 3.2. For all € G p» we have
(Ux/ZIG]- 87| = [(Clp)Y .

Proof. For M a Z[G]-module and v € Gp, it is direct to see that MV = (M'+7)¥
if ¥ is even and MY = (M'~")¥ if ¢ is odd. In particular, if v is even, we
get |(Ug /ZIG]-&)Y| = |(Clg)¥| = 1 and the result follows trivially in that case.
Assume now that v is odd. Let gy be the Stark unit corresponding to the extension
K /k, the set of places S(K/k) and the distinguished place v. Assume first that
S = S(K/k)U {p} for some finite prime ideal p of k not in S(K/k). It follows
from [Tate 1984, Proposition 1V.3.4] that ¢ = (1 — F,(K/k)) - &, where F,(K / k)
is the Frobenius at p for the extension K /k. By (A3), t is a power of F,(K /k)
and thus v (F,(K/k)) is a non trivial root of unity of order dividing |G|. Then
1 — ¥ (Fy(K/k)) is a p-adic unit and therefore (Z[G] - &)V = (Z[G] - &))¥. By
repeating this argument if necessary, we see that this last equality also holds in the
general case. Now, by taking g = f and o = 7 in the definition of Rgk, We see

that s(()rfl)/ 2= &y le Rstark. Therefore we have eg 161 - Rstark C Uk, and thus

et € REh C UE .
We take the 1-component, by the above remarks and the theorem, we get
Uk /ZIG1- &)Y | = [(Ug /Z1G] - E0)” | = [(UK ™ /571N |
> |(Ux /R | = (Ui / Rstan) V| = |Clg | = |(CL) Y.

Assume there exists a character ¥ for which this is a strict inequality. Multiplying
over all characters in ép, we get |(Uyg /Z[G]-8)®Z,| > |Cly ®Z,|, a contradiction
with Theorem 2.3. Therefore the equality holds for all ¢ G p and the theorem is
proved. (]

4. The index property

From now on, we do not assume anymore that the conjecture is true.
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From the results of the previous sections, we see that the conjecture implies that
there exists a unit € € Uy such that®

(P1) (Ug :Z[G]-&) =2°"5s|Clg |,
(P2) |(Ug/ZIG1-8)*| = |(Clg)¥ | forall p{[K : k]l and ¢ € G .

A priori the existence of a solution to (P1) and (P2) does not imply in return
the conjecture (except for quadratic extensions; see Theorem 5.5 below). Indeed,
in general, properties (P1) and (P2) do not even characterize the Stark unit . To
see that assume that 7} is a solution to (P1) and (P2), and let 7’ := u - 7, where
u € Z[G1* is a unit of Z[G]. Then i’ also satisfies (P1) and (P2). If u belongs to
{£y : y € G} C Z[G]*, the group of trivial units of Z[G], then 7’ is essentially
the same solution since it is a conjugate of 7 or the inverse of a conjugate of 7.
However there may be some non trivial units in Z[G] (see the end of this section)
and thus solutions to (P1) and (P2) that are not related in any obvious way to the
Stark unit. In any case, we have the following result that shows that solutions to
(P1) satisfy a very weak version of part (1) of the conjecture.

Proposition 4.1. Let 17 be an element of Uy, satisfying (P1). Then we have

1
4.5) [T 32 x@ioginti == T Li/s50.0.

x odd geG x odd

Proof. Let x € Uy . Using the notations of Section 2, we have [x?|; = |x]|; for
2m+1 < j < (d + 1)m since these absolute values are complex and 7 is the
complex conjugation. Since, by construction, we have x* = x~!, it follows that
|x|§ = |x1+’|j =1land |x|; =1for2m+1 < j < (d + 1)m. We can therefore
reproduce the determinant computation done in Section 2 replacing ¢ by n and
Ustark by the subgroup Uy of Uk generated by Ug+ and the conjugates of n. We
get

_ Rg+ 1
Uk :Up) =2 =2 [T 2 x(9) log [l
K odd © geG

We then proceed as in Theorem 2.3 by looking at the kernel of the norm map acting
on Uy/{=x1}. Since 5 satisfies (P1), it follows that

_1 Rk+ 1 _ _
2= [T 5 22 x(@) logln®l = £27" 11 |Cl .
K x odd geG

6Although assumptions (A1) to (A4) are necessary to prove that the Stark unit is a solution of (P2),
it is not necessary to assume (A4) to prove that solutions exist in the cases that we study below. It is
an interesting question whether or not one could prove that the Stark unit is a solution to (P2) without
having first to assume (A4).
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Then, by (2.4), we get the result

H > x(@loglnf| = Lois PR

X odd geCG

h+ +
KT RK 5 odd

We now turn to the study of the structure of the Q[G]-module Uy ® Q. Since U
iskilled by 147, itis a @[G]-module where Q[G]™ :=e~ Q[G] and ¢~ := %(1 —7)
is the sum of the idempotents of odd characters of G.” Since Uy injects into Uy ®Q,
we will identify it with its image. The following result describes the structure of
Ug ® Q as a Galois module.

Proposition 4.2. The module Uy @ Q is a free Q[G]™ -module of rank 1.

Proof. Let Y be the Q-vector space with basis the elements z in the set Sy (K) of
infinite places of K. The group G acts on Y in the following way: z¢ for g € G
and z € S (K) is the infinite place defined by x — z(x8) for all x € K. Denote
by ¥k the subspace of elements ) _a, z € Yk such that ) _a, = 0. Then the two
Q[G]-modules Xk and Ux ® Q are isomorphic by a result of Herbrand and Artin;
see [Artin 1932]. Fix a Q[G]-isomorphism f : Ux @ Q@ — X k. A direct computation
shows that X := f(Uy ® Q) is spanned by the vectors {w” — w?*},cg, where w
is the fixed place of K above v. In particular, & is generated as a Q[G]™-module
by the vector w — w®. This proves the result. (]

Corollary 4.3. There exist 6 € UE and q € Q* such that

[T 33 x@ioglesi=q [ Lis©. 0.

x odd geG x odd

Proof. From the proposition, there exists u € U @ Q such that U, @ Q =Q[G]™ -u
We let 0 :=n - u, where n € N is large enough so that 6 € Uy . Then we set

_ Uy :ZIG)-6)
2e+t|Cl;| ’

The result follows by the proof of Proposition 4.1 mutatis mutandis and replacing
g by —q if necessary. (]

Thanks to Proposition 4.2, it is enough to study the structure of Q[G]~ to
understand that of U ® Q. Let X be the set of irreducible Z-characters of G. Each

§ € X is the sum of the irreducible characters in a conjugacy class Cy of G under
the action of Gal(Q/Q). For & € X, we let

eg 1= Z e, € Q[G]

X EC&-
"Note that @G|~ is a ring with identity e~
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be the corresponding rational idempotent, where e, denotes the idempotent associ-
ated to the character x. We have

QIG] = P e:QIG1 =~ P a®),

EeX EeX

where Q(§) is the cyclotomic field generated by the values of any character in Ce.
Let X,4q be the set of Z-characters £ € X such that one, and thus all, characters in

Cs are odd. We have e™ = ZEE X, €& and from the above decomposition, we get
(4.6) QG = @ e:QIG1~ P Q@).
£€Xodd &€ Xodd

We now define Z[G]™ := e~ Z[G] and let O, be the maximal order of Q[G]™. We
have

4.7) 0;= P e:ziGl~ & zis).

&E€Xoad &€ Xodd

Now let p be a prime number. By (4.6), we get
(4.8) QG =~ P 0®)®eQ,~ P P k),

&€ Xodd E€Xodd PESs,p

where Sg , is the set of prime ideals of Q(&) above p and Q(§), is the completion
of Q(&) at the prime ideal p. On the other hand, each rational character £ € X is
the sum of irreducible Z ,-characters, say &§ = Zw eCe, Y, and we have

WGl =P P evpiG1

§€Xodd Y €Cs p

Therefore there is a bijection between the prime ideals in Sg , and the characters in
Ct,p. For p a prime ideal in S¢ ,, we denote by V¢ , the corresponding irreducible
Z ,-character. Before stating the first result, we need one more notation. Let 7" be a
set of primes. We say that an element u € Q[G]is a T-unitif u € Z,[G]™* for all
p €T, where Z,[G]* is the group of units of Z,[G]™.

Proposition 4.4. Let M be a sub-Z[G]™-module of Q[G]~ of finite index. Let x
be an element of M such that xZ| G~ has finite index inside M. Assume that y is
another element of M such that

(M :xZ[G])=(M:yZIG]") and (MV:(xZ,I[G]"))=M":(Z,[G]")Y)

forall p11|G| and all ¢ € G p With Y odd. Then there exists a unique B-unit
u € Q[G]™ such that y = ux, where B is the set of primes dividing both |G| and
(M : xZ[G]).
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Proof. Since Q[G]™ =xQ[G], there exists u € Q[G]~ such that y = ux. Assume
y =vx for another v € @Q[G]~. Then, for all £ € Xqq, we have &£ (u)&(x) =&(v)&(x).
Since £(x) # 0, it follows that £(#) = £(v) and thus by (4.6), we get u = v which
proves that u is unique.

Let p be a prime. Assume first that p does not divide |G|. Let £ € Xoqq4 and
p € 8¢, p. Write ¥ := ¢ , and denote by Z[£], := ¥ (Z,[G]™) the ring of integers
of Q(&),. Then MYV is an ideal of Z[&], and we have

(MY : (xZ,[G]7)Y) _ (MY Y (0)Z[E]yp)
MV (YZ,[GIT)Y) (MY (x)ZIE]y)

Thus V¢ p(u) 1s a unit in Z[&], for all § € Xoqq and p € S¢ , and thus u lies in
Z,|G]™*. Assume now that p does not divide the index (M : xZ[G]~). We have

= [ ().

MZy:xLy|Gl)=MQLZ, : yZy|G]) =1.
Therefore xZ,[G]" =M ®Z, = yZ,[G]” andu € Z,[G]™*. O
By Propositions 4.2 and 4.4, we get the following result.

Corollary 4.5. Let B be the set of primes that divide both |G| and |Cly|. Assume
there exist i) and i two elements of Uy, satisfying (P1) and (P2). Then there exists
a unique B-unit u € Q[G]~ such that ) =u - 1. [l

From this result and the discussion at the beginning of the section, one cannot
expect the properties (P1) and (P2) to characterize the Stark unit if Z[G]™ has some
non trivial B-units and a fortiori if Z[G]~ has some non trivial units.® It follows
from the methods of Higman [1940] that Z[G]™ has some non trivial units if and
only if O does. By (4.7), this is the case if and only if there exists an odd character
of G whose order does not divide 6. In particular, for G a cyclic group of even
order, Z[G]~ has only trivial units if and only if the order of G is at most 6. We
will prove in the next sections that there exist solutions to (P1) and (P2) in these
cases (with some additional conditions for sextic extensions). From this we will
deduce another proof of the conjecture for quadratic extensions and a weak version
of the conjecture for quartic and sextic extensions.

5. Algebraic tools

In this section we introduce some algebraic tools and results that will be useful
in the next sections. We start with the properties of Fitting ideals. Let R be a
commutative ring with an identity element. Let M be a finitely generated R-module.
Therefore there exists a surjective homomorphism f : R* — M for some a > 1. The

81f 7 is a solution to (P1) and (P2) and u is a B-unit then u - 7} is not necessarily a solution to (P1)
and (P2). A necessary and sufficient condition for that is that the linear map x — ux of Q[G]™ has
determinant 1. This is always true if « is a unit of Z[G]™.
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Fitting ideal of M as an R-module, denoted Fittg (M), is the ideal of R generated
by det(vy, ..., U,), where Uy, ..., U, run through the elements of the kernel of f.
One can prove that it does not depend on the choice of f. We will use the following
properties of Fitting ideals; see [Northcott 1976, Chapter 3] or [Eisenbud 1995,
Chapter 20].

o If there exist ideals A, ..., A; of Rsuchthat M ¥~ R/A; &---® R/A,, then
we have
Fittg (M) = A - - - A;.

e Let T be an R-algebra. We have
Fitty (M @g T) = Fittg(M)T.
o Let N be another finitely generated R-module. We have
Fittg (M & N) = Fittg (M)Fittg (N).
Lemma 5.1. Let M be a finite O;-module. Then
|M| = 1(Og/Fittg_ (M))].
Proof. We have

(Og : Fittg_ (M)) = [] (e:Z[G1: exFitte (M) = [ ] (ZI£]: Fittzgz) (e M)).
£€Xodd §€Xodd

Fix & € Xoqq. Since eg M is a finite Z[£]-module, there exist ideals ay, ..., a, such
that
esM=Z7[§]/a1 ©--- D Z[§]/a,.

Therefore Fittzg1(es M) = a; - - - a, and
(Z[&] : Fittzg)(es M)) = Nae)ya(ar -+ - a,) = |es M|.
It follows that (O : Fitt@(—} (M)) = HéeXodd les M| = |M]. ([l

Lemma 5.2. Let M be a finite Z[G] -module. Let p be a prime number not
dividing |G| and let r be an odd irreducible 7 ,-character. Then

IMY | = |(ZIG]™ /Fittzio1- (M))”| = |05 /Fitte_ (M) |.

Proof. We have (Fittzg)-(M))V = Fittz,1y1(M"). Since MV is a finite Z,[¢]-

module, there exist integers cy, ..., ¢, > 1 such that
r
MY ~P7,[¥1/p°,
i=1

where p is the prime ideal of Z,[v/]. Then Fittz[g;- (M) = p¢ withc:=c1+---+cr
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and therefore |(Z[G]~ /Fittzjg1-(M))V| = (Z,1£] : p°) = [MV|. The last equality
is clear since (@5)‘” =Z,[V¥]. U
In what follows we will also use repeatedly the Tate cohomology of finite cyclic

groups; see [Lang 1994, §IX.1]. Let A be a finite cyclic group with generator a and
let M be a Z[A]-module. The zeroth and first group of cohomology are defined by

HA, M):=M"/Ns(M) and H'(A,M):=Ker(Ns: M — M)/(1 —a)M,

where Ny :=) ", ,band M A is the submodule of elements in M fixed by A. Let
N and P be two other Z[A]-modules such that the following short sequence is
exact:

1 M N p 1.

Then the hexagon below is also exact.

HY(A, M)
H'(A, P) A%A, N)
(5.9 T l
H'(A, N) A%A, P)
HY(A, M)
The Herbrand quotient of M is defined by
|HO(A, M)
OA, M) = """
|H'(A, M)|

The Herbrand quotient is multiplicative, that is for an exact short sequence as above,
we have Q(A, N) = Q(A, M) Q(A, P). The following result plays a crucial role
in the next sections. It is a direct consequence of [Lang 1994, Corollary 1X.4.2].

Lemma 5.3. Let E/F be a quadratic extension with Galois group T. Let R > 0 be
the number of real places in F that becomes complex in E. Then we have

O(T, Ug) =281, O

We use this result in the following way. Assume that R > 1. Write Uy and Ug
for the group of units of F and E respectively modulo {£1}. Then we have

UF UF

HY T, Up) = ———— = {1} x —————,
( E) -NE/F(UE) { }X NE/F(UE)
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since —1 cannot be a norm in E/F. It follows from the lemma that |I:I 0T, Ug)|is
divisible by 28! and therefore

(5.10) 2821 (UF : Ngsr(Up)).

In some cases we will not be able to get non trivial lower bounds with that
method, but still be able to deduce that A (T, Ug) is trivial. In this situation, we
have the following lemma.

Lemma 5.4. Let E/F be a quadratic extension with Galois group T. Assume that
H'(T, Ug) is trivial. Then either E/F is unramified at finite places or there exists
an element of order 2 in the kernel of the norm map from Clg to Clp.

Proof. Consider the submodules of elements fixed by 7" in the short exact sequence

1 Ug E* Pg 1.
We get

1 Ur F* pr HY T, Ug) —--- .

Since H\(T, Ug) = 1 by hypothesis, it follows that the groups Pr and Pb? are
isomorphic. The isomorphism is the natural map that sends a € Pr to aZg € P[,
where Zf is the ring of integers of E. Assume that there is a prime ideal p of F
that ramifies in £/F. Let *J3 be the unique prime ideal of E above p and let & > 1
be the order of 913 in Clg. Since P e P, there exists a principal ideal a € P such
that 9p" = aZg. Clearly a is a power of p. Looking at valuations at 3, it follows
that 4 is even. We set € :=PB"/2. Its class is an element of order 2 in Clg. But
Ng/r(€) = p"/? = a is a principal ideal. This concludes the proof. ([l

To conclude this section we prove the conjecture in our settings when K/k
is a quadratic extension. This result is proved in full generality in [Tate 1984,
Theorem IV.5.4].

Theorem 5.5. Let K/k be a quadratic extension and S O S(K /k) be a finite set
of places of k satisfying (A1), (A2) and (A3). Then the abelian rank-one Stark
conjecture is satisfied for the extension K [k and the set S with the Stark unit being
the unique solution, up to trivial units, of (P1) and (P2). Moreover the Stark unit is
a square in K if and only if e +1ts +c > 1, where c is the 2-valuation of the order of
Cly. In particular, if d > 4 then it always a square and, in fact, it is a 243
It is also a square if d = 3 and the extension K / k is ramified at some finite prime.

-th power.

Proof. The only non trivial element of G is 7. Let x be the character that sends ©
to —1. It is the only non trivial character of G and also the only odd character. We
have Z[G]™ =0, = e~ Z >~ 7. In particular, using Proposition 4.2, it is direct to
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see that there exists § € U g suchthat Uy =7 6. Define
i :=2T"5|Cly | - 6.

From its construction, it is clear that 5 satisfies (P1) and (P2). It follows from
Proposition 4.1, and replacing 1 by n~! if necessary, that

1
5 2 x(®)logIn®| = L/ (0, ).
geG

This proves part (1) of the conjecture. Part (3) is direct by construction. It remains
to prove part (2). But (t — 1) - n = —2- 5 so part (2) follows and the conjecture is
proved in this case. Finally, from its definition, it is clear that 5 is a 2"-th power
in K* if and only if e + g + ¢ > r. Now, by (5.10), we have ¢ > d — 3 and
therefore the Stark unit is always a square if d > 4. Assume that d = 3 and that
n is not a square. Then e = 0 and |ﬁO(G, Uk)| = 2. From Lemma 5.3, we get
H! (G, Ug) =1 and therefore, since ¢ = 0, the extension K /k is unramified at
finite places by Lemma 5.4 ]

When d = 2, there exist extensions for which the Stark unit is a square and
extensions for which it is not a square. Using the PARI/GP system [PARI 2011],
we find the following examples.9 Let k := @(\/5) and let vy, vo denote the two
infinite places of k with v1(+/3) < 0 and v2(+/5) > 0. Let K be the ray class
field modulo p; v, where py; ;= (1/2 + 3\/3/2) is one of the two prime ideals
above 11. Then K /k is a quadratic extension that satisfies (A1), (A2) and (A3)
with § := S(K/k), and one can prove that the corresponding Stark unit is not a
square. Now, on the other hand, let K be the ray class field modulo /53¢ v;, where
qi1 := (1/2 —3+/5/2) is the other prime ideal above 11. Then K /k is a quadratic
extension that satisfies (A1), (A2) and (A3) with S := S(K/k) and, in this case, the
Stark unit is a square. When d = 3 and K /k is unramified both cases are possible.
Indeed, let k := Q(c), where o> —a> — 13a+1=0. It is a totally real cubic field. Let
v1, U2, v3 be the three infinite places of k with v; (o) ~ —3.1829, v, () ~0.0765 and
v3(a) & 4.1064. Let K be the ray class field of k of conductor Z;v,v3. Then K/ k is
a quadratic extension that satisfies (A1), (A2) and (A3) with S := S(K/k), and that
is unramified at finite places. One can prove in this setting that the Stark unit is not a
square. On the other hand, let k := Q(B) with 8> — 82 —248 —35=0. It s a totally
real cubic field. Let vy, vy, v3 be the three infinite places of k with vy () &~ —3.0999,
vy (o) & —1.8861, and v3 () =~ 5.9860. Let K be the unique quadratic extension of
k of conductor Zyvov3. Then K /k satisfies (A1), (A2) and (A3) with S := S(K/k)
and is unramified at finite places. One can prove that k is principal and the class
number of K is 2. Therefore the Stark unit in this case is a square.

9PARI/GP was also used to find the examples given in the next two sections.
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6. Cyclic quartic extensions

Theorem 6.1. Let K /k be a cyclic quartic extension and S D S(K / k) be a finite
set of places of k satisfying (A1), (A2) and (A3). Then there exists 1) € Uy satisfying
(P1) and (P2). Furthermore, 1) is unique up to the action of =G, it satisfies

> x(@)logn®|| forall x €G,

geG

1
L /x50, 0)| = 3

and the extension K (\/n)/k is abelian.

Proof. Denote by y a generator of G, therefore = y2. Let x be the character of
G such that x(y) =i and let§ := x + x> be the only element in X,qq4. From the
results of Section 4, we have

QIG] =e Q[G] = Q>),

where the ring isomorphism sends any element of x € Q[G]~, written uniquely as
x=e (a+by)fora,beQ,to x(x) =a+ bi. In particular, we have Z[G]™ =
O; >~ Z_[i] and Z[G]™ is a principal ring._ By Proposition 4.2, this implies that there
exists § € Ug such that Uy = Z[G]™ - 6.

We now prove the uniqueness of the solution. Assume that 7 and 7" are two
solutions to (P1) and (P2). By Corollary 4.5, there exists a unique 2-unit « in
Q[G]™ such that 7’ =u - 7. Let ps := (i + 1)Z[i] be the unique prime ideal above
2 in Z[i]. Let n := vy, (x(u)). Assume, without loss of generality, that n > 0
(otherwise, exchange 7 and 7’ and replace u by u~') and therefore ' € Z[G]™ - 7.
Let x € Z[G]~ be such that 7 = x - 6. We have

(ZIG]” -7:ZIG]” -7') = (xZ[G]™ :uxZ[G]")
= (x()Z[i]: x () x (x)Z[i])
=[x (u)| =2".

Therefore n = 0 and u is a unit. Since the only units of Z[i] are =1 and =i, it
follows that u = e~ g with g € G. This proves the uniqueness statement.

Next we prove that there exist solutions to (P1) and (P2). Let & :=Fittz}- (Cly)
be the Fitting ideal of Cl as a Z[G]™-module. Let f be a generator of F. We set
7= f (y +1)¢t's.6. We have by Lemma 5.1

(Ug - ZIG]-17) =2 (ZIG]™ : F) =275|Clg .

Thus 7 is a solution to (P1). In the same way it follows directly from Lemma 5.2
that it is a solution to (P2).
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Now, since 17 € Uy, we have for v = o, the trivial character, or v = XZ that
1
3 2 v(®)log|yf| =0.
geG
On the other hand, L', Ik, s(v, 0) = 0 follows directly from [Tate 1984, Proposi-
tion 1.3.4]. From Proposition 4.1, using the fact that x> = ¥, we get!?

2
L /550 0| = L .50, X)Ll /150, %)

= (% > x(g)log Ingl) (% > x(g)log Ingl)

geG geG
2

- ‘% > x(@)log |
geG
and the equality to be proved follows by taking square roots.
Finally, to prove that K (,/n)/ k is abelian, we need to prove that (y —1)-n€2-Ug
by [Tate 1984, Proposition IV.1.2]. This is equivalent to proving that

(= DG+ DTS x(f) C220i],

that is one of the following assertions is satisfied: e > 1, g > 1 or 2 divides |Cl|.
We have e > 2d — 4 by (5.10) and therefore the result is proved if d > 3. Assume
that d = 2 and e = 0. Then it follows by Lemma 5.3 that H! (T,Ug) =1, where
T :=(r). By Lemma 5.4 this implies that either 2 divides |Cl | and the result is
proved, or K/K™* is unramified at finite places. Assume the latter. At least one
prime ideal of £ ramifies in K by the proof of [Roblot 2000, Lemma 2.8] since k
is a quadratic field. By (A3) this prime ideal is inert in K /K™, thus g > 1. This
concludes the proof. ([

A consequence of this result is that we can say quite precisely when the Stark
unit, it exists, is a square in that case. The result is very similar to the situation in
the quadratic case (see Theorem 5.5).

Corollary 6.2. Under the hypothesis of the theorem and assuming that the Stark
unit exists, then it is a square in K if and only if e + ts + ¢ > 2, where c is the
2-valuation of |Cl|. In particular, if d > 3 then it is always a square and, in fact,
it is a 2972-th power.

Proof. We prove the equivalence. The inequality is satisfied when the Stark unit
¢ is a square by Corollary 2.4. Now assume that the inequality is satisfied. By
the uniqueness statement of the theorem, we have € = 5 (replacing n by one of its
conjugate if necessary). From the proof of the theorem, we see that 7 belongs to

10Note that is easy to see that both sides of (4.5) are positive in this case.
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2" . Uy if and only if (i + 1)¢*ts x (f) € 2"Z[i). Taking valuation at p;, the only
prime ideal above 2, we see that it is equivalent to e 4 ts + ¢ > 2r. This proves the
first assertion. Now, to prove the second assertion, we see that e > 2d — 4 by (5.10).
Therefore 7 lies in 2972 - U . This proves the result. O

When d = 2 it is possible to find examples for which the Stark unit, if it exists,
is a square and examples for which it is not a square. For example, let k := Q(+/5)
and let vy, vy denote the two infinite places of k with vy (\/3) <0 and vz(\/g) > 0.
Let K be the ray class field modulo py9v;, where pog := (11/2 — «/5/2) is one of
the two prime ideals above 29. Then K /k is a cyclic quartic extension that satisfies
(A1), (A2) and (A3) with § := S(K/k) and one can prove that, if it exists, the
Stark unit is not a square. Now, on the other hand, let K be the ray class field
modulo \/§p41 vy, where p41 :=(13/2— NG /2) is one of the two prime ideals above
41. Then K /k is a cyclic quartic extension that satisfies (A1), (A2) and (A3) with
S := S(K/k), but one can prove that, in this case, the Stark unit, if it exists, is a
square.

7. Cyclic sextic extensions

In this final section we study the case when K /k is a cyclic sextic extension. We
will need some additional assumptions to be able to prove that there exists solutions
to (P1) and (P2).

Theorem 7.1. Let K /k be a cyclic sextic extension such that (A1), (A2) and (A3)
are satisfied with S := S(K /k) . Assume also that 3 does not divide the order
of Clg and that no prime ideal above 3 is wildly ramified in K / k. Let F be the
quadratic extension of k contained in K. Then there exists n € Uy satisfying (P1)
and (P2) and such that Nk () is the Stark unit for the extension F [k and the set
of places S. Furthermore, 1) is unique up to the action of an element of Gal(K / F),
satisfies for all x € G

> x(g)log|nf|

geG

’

L1500, )| = !
’ 2

and the extension K (,/n)/k is abelian.

Proof. Let y be a generator of the Galois group G, thus T = y3. Let x be the
character that sends y to —w, where w is a fixed primitive third root of unity. It is a
generator of the group of characters of G. We have X oqq = {£2, &}, where & = x3
and & := x + x°. The corresponding idempotents are

e, =5(1=y)A+y +yH and eg =51 —yH2—y>—p?.
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We have the ring isomorphism
(7.11) Q[G]” =e;,Q[G] +e5Q[G] = Q & Q(w).

Let o := y? and let H be the subgroup of order 3 generated by o. Any element
g € Q[G]™ can be written uniquely as g = ¢~ h, where & is an element of Q[H].
The map g + h is a ring isomorphism between Q[G]~ and Q[H ], that restricts to
an isomorphism between Z[G]~ and Z[ H]. From now on, we will identify Q[G]™
and Q[H]. Note that, with that identification, both act in the same way on Uy,
Uy ® Q, Cly, etc. Let ey and e be the image by the projection map of eg, and
eg. Then ey = %(1 + 0 +0?) is the idempotent of the trivial character of H and
el = %(2 — o —0?) is the sum of the idempotents of the two non trivial characters
of H. The main difference between this case and the quartic case is the fact that
the isomorphism between Q[ H] and Q & Q(w) does not restrict to an isomorphism
between Z[G]™ and Z @ Z[w]. In particular, Z[G]™ is not a principal ring. Because
of that the proof is somewhat more intricate than in the quartic case. We will
therefore proceed by proving a series of different claims. First, we define

(7.12) O:=eyZ[H]+e1ZIH]| =27 & Z|w].
Note that, by the above identification, we have O = 0.

Claim 1. The ring O is principal and contains Z[ H] with index 3.

Let $ be an ideal of O. Then ¢y is an ideal of ¢pZ ~ Z. Thus there exists a € Z
such that ep$ = aegZ[H]. In the same way, e is an ideal of ¢;Z >~ Z[w]. Since
Z|w] is a principal ring, there exists b, c € Z such that e;.$ = e1(b+co)Z[H]. One
verify readily that ega + e (b + co) is a generator of $. To conclude the proof of
Claim 1, we note that O/Z[H] = (eo + Z[H]) = (e1 + Z[ H]) clearly has order 3.

Claim 2. Let s be an ideal of Z| H] of finite index. Then there exists g € s such

that

(7.13) 0/A40 ~7Z[H]/gZ[H].

Furthermore, d = gZ[H] if A is a principal ideal. Otherwise (A : gZ[H]) = 3.
We prove this claim by considering the two cases: d0 # o and A0 = .

Claim 2.1. Assume that A0 # A. Then A is a principal ideal.

Let g’ = epa + e1(b + co) be a generator of the principal ideal 40 of 0. If
e1(b+co) e A, then eyd = e1(b+ co)Z[H] C o and it follows that { = HO,
a contradiction. Therefore A0/ = (e;(b + co) + ) has order 3. Thus one
of the three elements: ega + e, (b + co), epa — e1(b + co) or epa belongs to A.
It cannot be epa since that would imply, as above, that s§ = {0. Denote by g
the one element between epa £ e (b + co) that lies in . Clearly we still have
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g0 = A0. Now, g is not a zero divisor since & has finite index in Z[H], so we
have (g0: gZ[H]) = (0 : Z[H]) = 3. Therefore we get

. _ (g0:gZ[H])
(éﬂ-gZ[H])——(&g@:&g) =

and o = gZ[H]. Equation (7.13) follows in that case from the equality
(7.14) (0:A40)(AOC: 4) = (0:Z[H))(Z[H] : A)
and the fact that (0 : ) = (0 : Z[ H]) by the above.

Claim 2.2. Assume that A0 = A. Then A is not a principal ideal, but there exists
g € A such that (A : gZ[H]) =3.

Let g be a generator of the principal ideal {0 of 0. Since 40 = A, g lies in A
and we compute as above

(sd : gZ[H]) = (A0 : g0)(g0: gZ[H]) = 3.

Since (0: Z[H)(Z[H]:4) =3(Z[H]:4) = (A :gZ[H))(Z[H]:A) = (Z[H]:
gZ[H]) and (A0 : o) =1, Equation (7.13) follows from (7.14). It remains to prove
that &{ cannot be principal in that case. In order to prove this, we need another
result. Let x € 0. By the isomorphism in (7.12), it corresponds to a pair (xg, x1) in
Z @ Z|w]. We define the norm of x as the following quantity

Norm(x) := |xg| No@w)/a(x1).

Note that we recover the usual definition of the norm of Q[H] as a Q-algebra. The
proof of the following claim is straightforward and is left to the reader.

Claim 3. Let x € O with Norm(x) # 0. Then (0 : x0) = Norm(x). If furthermore
x € Z[H] then (Z[H] : xZ[H]) = Norm(x).

We now finish the proof of Claim 2.2. Assume that s is principal, say s{ =hZ[H].
Then there exists z € Z[H] such that g = hz and we have (0 : zO) = 3. Thanks
to the above claim, we can explicitly compute all the elements z € O such that
(0:z0) = 3. There are the elements z =epa+e;(b+co) witha==+1and b+co €
{(£(1+20),£2+0), (1 —0)},ora==23 and b+ co € {£1, +o0, £(1 +0)}.
One can compute all possibilities and check that none of those belong to Z[H].
This gives a contradiction and concludes the proof of Claim 2.2 and of Claim 2.

We now turn to the Z[ H]-structure of U . The principal result is the following
claim that we will prove in several steps.

Claim 4. There exists 6 € Uy such that Uy = Z[H] - 6.
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Let 6 € Ug be such that Uy ® Q = Q[H] -6'. Note that the existence of 6’
follows from Proposition 4.2. We define

A:={xe@[H]:x-0_’eU;}.

It is a fractional ideal of Z[H]. The above claim is satisfied if and only if it is a
principal ideal. Assume that this is not the case. Then, by the above, we have!'!
A0 = A. Recall that F denotes the subfield of K fixed by H. It is a quadratic
extension of k and Gal(F/k) = (tr). We define U as the kernel of the norm
map from Ur/(£1) to Uy/(£1). We have also U, = U N (F*/{£1)). Let
Ny =140 + 02 It is the group ring element corresponding to the norm of the
extensions K/F and KT/ k.

Claim4.1. AO=Aifandonlyif Ngy-Ug =3-U,. If AO# A, then Ng-Ug =Up.

We have AO = A if and only if egA C A, thatis Ny - Uy C 3-Uj . Assume that
it is the case. Let § € Uy and set k := Nk ,r(8) € Ur. Then the polynomial X3 —«
has a root, say v, in Ug. If v does not belong to F' then all the roots of X 3k
belongs to K since K/ F is a Galois extension. It follows that K contains the third
roots of unity, a contradiction. Therefore v € Uy and Ny - U, C 3-Ug. The
other inclusion is trivial and the first assertion of the claim is proved. If A0 # A
then 3-Up & Ny -Ug C Up. Since U is a Z-module of rank 1, it follows that
Ny -Ug = Upg. The claim is proved.

Let & be the set of prime ideals of K that are totally split in K/k. Denote by
Ik o the subgroup of Ik, the group of ideals of K, generated by the prime ideals in
. Then, by Chebotarev’s theorem, the following short sequence is exact

1 —— PNy I Cly " —— 1

where Pk is the group of principal ideals of K. We take the Tate cohomology of
this sequence for the action of H. Since 3 does not divide the order of Clg, it
does not divide the order of Cl}(_r and H O(Cl}(_f) = H 1(Cl}(_f) = 1. Note that
here and in what follows, to simplify the presentation, we drop the group H in
the notation of the cohomology groups and write H'(M) instead of H'(H, M) for
M a Z[H]-module. It follows from the exact hexagon (5.9) for the above exact
sequence that H'(Pg N Ié};) ~ Fli(lll(jsi) fori =0,1. Let2A € Pg N I}Q_gf. There
exist o € K, the subgroup of elements of K* supported only by prime ideals in
¥, and B € Ik ¢ such that

A= (a) =B 7.

1]Strictly speaking, the claims above are only for integral ideals of Z[ H] but they admit obvious
and direct generalizations to fractional ideals.
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We apply 1 — t to this equation
-7 _ (a)l—r _ ;B(l—r)2 _ (;Bl—z)z — 92

Therefore we have (Px N1 gf )2 C Pll( 4, where Pk g is the subgroup of princi-
pal ideals generated by the elements of K. It follows that the quotient (Px N
III( Jf)/P[l( o is killed by 2 and therefore Hi(Px N I,l( g) = H (Pll( 4) fori =0or
1. We have proved the following claim.
Claim 4.2. HO(Py )~ H(Iy }) and H'(Py ) ~ H' (I} ).

Letu e Uy N (Ky,)l_f. There exists o € Ky) such that u = «!~7. Therefore

— —1)2 —
Ml ‘E:a(l T) :(Oll 1)2:u2'

Reasoning as above, this implies that Hi(Ug N (Kg,f)l_f) = I-}i(Ull(_T) = I-}i(UI;)
for i =0, 1. We now consider the short exact sequence

1 —— Ug N(K)'T —— (KH' T P}{; 1.

Taking the Tate cohomology and using the above equalities, we extract the following
exact sequence from the exact hexagon (5.9) corresponding to this exact sequence

(7.15) - —— H'(Py§) —— H'Ug) — HO((K)'™H) —— -

The next claim is just a reformulation of the first part of Claim 4.1.
Claim 4.3. AO = A ifand only if H*(Ug) ~7/37.
Assume the two followings claims for the moment.

Claim 4.4. H'! (P g;) is trivial.
Claim 4.5. HO((K;)'™7) is trivial.

By (7.15) we get that I-AIO(UI;) = 1. Thus A0 # O by Claim 4.3 and therefore A
is principal by Claim 2.1, and Claim 4 follows. It remains to prove Claims 4.4 and
4.5. We start with the proof of Claim 4.4. By Claim 4.2, this is equivalent to prove
that H' (I - ) is trivial. We have as Z[ H ]-modules

1—t
ng=11 ( 1_[%132) ~ [Ta-oza.

po€fo ~ Plpo poeYo

where ¥ is the set of prime ideals of k that splits completely in K/k, 3 runs
through a set of representative of the prime ideals of K dividing po under the action
of 7 and the ’ indicates that it is a restricted product, that is the exponent of 3 is
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zero for all but finitely many prime ideals. The isomorphism comes from fixing a
prime ideal above pg and the fact that pg is totally split in K/k. Therefore we have

H'(y = [[H' W -0zIG) ~ [] H'@IH)).

po€So poe%o

It is well-known that H'! (Z[H]) = 1, thus Claim 4.4 is proved.

To prove Claim 4.5, we prove that the norm from (K;,f)l_r to (Fgf)l_f is surjec-
tive. Let ' 7 € (Fff)l_f. By the Hasse Norm Principle, &'~ is a norm in K /F
if and only if it is a norm in K3/ F}, for all prime ideals 3 of K, where p denotes
the prime ideal of F below ‘. If p splits in K/F, then o'~ is trivially a norm in
K3/ Fy. Assume now that p is inert. It follows from the theory of local fields; see
[Lang 1994, §X1.4], that the norm of Kq3/F}, is surjective on the group of units of
F,. But «'~7 is a unit at 3 since P ¢ &, and therefore it is a norm also in this case.
Finally we assume that B3 is ramified in K/F. Let p be the rational prime below 3.
By hypothesis, p # 3 since 3 is not wildly ramified in K /k. Write gy, Ugs, pp and
Uy, for the group of roots of unity of order prime to p and the group of principal units
of Ky and Fy respectively. We have wg = pp and therefore Nk, r, (Lp) = MS
On the other hand Nk, (Up) = [U?J = Uy and the norm is surjective on principal
units. Since P ¢ &, vy(a) =0 and o = {u with ¢ € pup and u € U,. It follows
from the above discussion that '~ is a norm in Ky/F, if and only if ¢'~7 € 7.
Let pg be the prime ideal of k below p. Assume first that pg is ramified in F/k.
Then pp, C ky, and ¢17F = 1, thus @' =7 is a norm in Kq3/Fy. Assume now that po
is inert'? in F/k. Denote by f the residual degree of po. The group Ip, of Toots
of unity in ky, of order prime to p has order p/ — 1. Let P+ := PN K". The
extension K$+ / kp, 18 a tamely ramified cyclic cubic extension. Therefore it is a
Kummer extension by [Lang 1994, Proposition I1.5.12] and kj, contains the third
roots of unity, that is 3 divides p/ — 1. Since  is the Frobenius element at pg of the
extension F/k, we have {177 = Cl_Pf = (§(l_l’f)/3)3 € ,ug and therefore o' 7 is a
norm in Ksz/F,. We have proved that «'~7 is a norm everywhere locally. It follows
by the Hasse Norm Principle that there exists € K* such that Nx,r(B) = al T,
Let I3 be a prime ideal of K not in & and, as above, let p be the prime ideal of F
below . Assume first that 3 is ramified or inert in K/ F', then vp(B) = vy (')
or %vp (') respectively. In both cases we get vz(B8) = 0 since « € Kg;. If P is
split in K /F then it must be inert or ramified in K /K™ by (A3). It follows that
vqg(,Bl_T) =0. Therefore § :=B!~7 e K5 . We now compute

_ Y] _ _ 3
N7 = Nk p(B)177 = (@ 7)207) = (@177,

12By (A3), it cannot be split in F/k.
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Thus «!~7 is the norm of (§/a)!~7 € (K;f)l_f. This concludes the proof of
Claim 4.5 and therefore also the proof of Claim 4. The next claim follows from
Claim 4.1 and the fact, seen in the proof of Claim 4, that AO # A.

Claim 5. Ny -Ug =Up.
Let & := Fittz)(Cly) be the Fitting ideal of Cly as a Z[H]-module. Apply

Claim 2 to the ideal % and call f the element of % such that O/F0~Z[H]/fZ[H].
Set i’ := f - 6. Thanks to Claim 4, we find that

(7.16) (Ug : ZIH]-7) = (ZIH]: fZ[H]) = (O : FO) = |Cly].

For this last equality, we first use the fact that, since 3 does not divide the order of
Cly, we can make ep and e; act on it and see it therefore as an O-module. By the
properties of the Fitting ideal, %0 is the Fitting ideal of Cl, as an O-module and
the equality follows from Lemma 5.1.

Claim 6. Let n, m > 0 be two integers. Then there exists k, ., € Z|H], unique up
to a trivial unit, such that

(7.17) Norm(k, n) =2"""  and ek m = eo2".

We define
Knm =2"eq+ (—=1)"T"2"ey.

It is clear from its construction that «, ,, satisfies (7.17). One can see also directly
that k, ,, € Z[H] since 2 = —1 (mod 3). It remains to prove the uniqueness
statement. Clearly egk;, ;, is fixed by construction. On the other hand e«; ,, is an
element of norm 22 in e, Z[H] ~ Z[w]. Since 2 is inert in Z[w], there exists only
one element in Z[w] of norm 22" up to units. This concludes the proof of the claim.

Let ¢’ € N be such that 2¢ = (U : N(Up)).
Claim 7. The integer e — €' is nonnegative and even.

We consider the natural map Uy — Ug+ Al (Uk) that comes from the inclusion
Uy C Ug+. Let u € Uy be in the kernel of this map. Thus there exists x € Uk such
that u = N(x). Set y := Ny -x —u € Up. We have

NP) =Ny -NX =N@)=3-a—2-a=i.
Therefore the kernel of the above map is N'(Ur) and there is a well-defined injective

group homomorphism from Uy /N (Ur) to Ug+/N(Ug). This proves that'3
The cokernel of this map is

Ug+/N(Uk)
Ue/N(UF)

e>eé.

(7.18) ~ Ug+ /(U + N(Uk)).

13 This inequality follows also from Claim 10 below.
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It is a finite Z[H]-module of order 2¢~¢. In particular, the idempotents ey and
er act on it. We have ey - Ug+/(Uy + N(Ug)) = Ny - Ug+ /(Ui + N(Up)) = 1.
It follows that UK+/(Uk +NUg) =e; - UK+/(Uk + N(Ug)) is a Z[w]-module.
Since 2 is inert in Z[w], the order of UK+/(Uk + N(Ug)) is an even power of 2.
This concludes the proof of the claim.

Let & 1= Ker g5, (e—ery/2- We define
(7.19) ni=xak-7
The sign will be chosen in the proof of the next claim. We have
(Ug :ZIH]-0) = (Ug : Z[H] -7 )(ZIH] - 7" : Z[H]k - 77')
= |Clg| Norm(k) = 26“S |Clk|

using (7.16), Claim 3 and the definition and properties of «. Therefore, 1 satisfies
(P1). Let p be a prime not dividing [K : k] and let ¥ be an odd irreducible Z -
character. By the construction of 1" and the fact that p is odd and « is a 2-unit, we
find that

Uk /ZIHT- )| = |(Ug /ZIH]- 7)Y | = [©0/F)"] = |(Cl)Y |
(the last equality comes from Lemma 5.2). Hence 7 is also a solution to (P2).
Claim 8. Up to the right choice of sign in (7.19), we have
1
3 2 X (@ loglnfly = Lic 50, x).
geG

The Z[H]-module Uy /(Z[H]- 1) has order not divisible by 3 since 7 satisfies
(P1). Thus it is a O-module and we can split it into two parts corresponding to the
two idempotents eg and e;. On the one hand, using Claim 5, we have

eo- (U /ZIH]-7) = Nu - (Ug /ZIH]- 1) ~ Uz /Z - 7F,
where 1 := Ny -1 € Up. On the other hand, we compute
er- (U /ZIH]-7]) = e\ (ZIH]/c fZIH]) = Z[w] /2~ F),

where %, is the Fitting ideal of (Cly)*' viewed as an Z[w]-module. Indeed, by
construction, ey fZ[ H] = e %0 > Fittz,, ((Cl;)"). Since Cl = (Clx ) @ (Cl )
and (Cl;)® ~ Ng,r(Cly), we have

|ICl¢ |
[Nk /r(Cly)l

Claim 8.1. Nkr(Clg) = Cly.

(Zlw] : F1) = [(Cl)' | =
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Consider the composition of maps Cl, — Cl — Cl ., where the first map is the
map induced by the lifting of ideals from F to K and the second map is the norm
Nk F. This is the map of multiplication by 3 and therefore, if the order of Cl is
not divisible by 3, it is a bijection and the claim is proved. Assume that 3 | |Cl|.
Let hg denote the class number of a number field E. Thus hy :=|Clg | =hg/hg+
and hy :=|Cl;| =hp/hi. If K/F is ramified at some finite prime then & r divides
hi. As hy divides hp, it follows that 3 | hg, a contradiction. Assume now that
K /F is unramified at finite primes. Therefore 3 divides iy and h /3 divides hg.
In the same way, Kt /k is unramified and therefore 3 divides /. Since 3 | hr, this
implies that 9 divides i and therefore 3 divides ik, a contradiction. It follows
that 3 does not divide |Cly| and the claim is proved.

Putting together the claim and the computation that precedes it, we find that
(Ug - Z-1) |Cly|

7.20 U, :Z -np)= -
(7.20) Wr:2-5ip) = =5

= 2151 .

Let BT € Sk+ and denote by pg the prime ideal of k below B+. Then P is
inert in K/K™ if and only if pg is inert in F/k. Furthermore, if B is inert in
K /K™, then it is ramified'* in K*/k and it is the only prime ideal in Sg+ above
po. It follows that the number g of prime ideals in S+ that are inert in K/K ™ is
equal to the number of prime ideals in S that are inert in F'/k. Therefore nr satisfy
the properties (P1) and (P2) for the extension F/k and the set of primes S. As a
consequence of Theorem 5.5, we see that either nr or n;l is the Stark unit for the
extension K /F and the set of places S. By choosing the right sign in (7.19), we
can assume that i is the Stark unit. Therefore we have

500g [nFlw +v(T)10g [Nfw) = L 5(0, v),

where v is the non trivial character of F/k. It follows from the functorial properties
of L-functions that Lr/i s(s,v) = Lg/k, s(s, x>), and from the definition of nr
that

log [1F|w + V() log [n5lw = D x*(g) log n%w.
geG

This completes the proof of the claim.

Now, by Proposition 4.1, we know that

(% > x(@)log |ng|) (% > (e log |ng|) (% > () log |ng|)

8€G geG geG
=L 150, X)L /150, X7 L 11 (0. X°).

4Recall that S = S(K /k).
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We cancel the non zero terms corresponding to x> using Claim 8 and, since x and
x> are conjugate, we get

2
= (% > x(@ loglngI) (% ZXS(g)loglng|)

geG geG

1
‘EZx(g)loglngl

geG
=L ;.50 X)L /150, x7) = Ly . 5(0. )1

Taking square roots, we get

=L 150, 01 =L 5 50, x|

1
=‘§Zx5(g)loglngl

geG

1
‘EZx(g)IOglngl

geG

Note that we have directly using [Tate 1984, Proposition 1.3.4]

1 1 1
5 2 xo@loglnfl=5 3 x*@logln®l =5 3 x*(g)logln®|
geG geG geG

=L /.50, x0) = L /4 50, x*) = L ;. 5(0. x*) =0.

We now prove that 1 is unique up to multiplication by an element of H. Assume
that 77’ is another element of Uy satisfying (P1), (P2) and such that Ny - 77’ is
the Stark unit for the extension F/k and the set of places S. Let u € Q[H]
be such that 7" = u - 7. By Corollary 4.5, u is a 2-unit. Now, by hypothesis,
Nr=Ng-(u-n)=u-(Nyg-n) =u-nr and thus egu = ¢y. Write u for the element
of Q(w) such that (1, u;) corresponds to u by the isomorphism in (7.11). Since
both 7 and 7’ satisfy (P1), we have Norm(u) = 1 and thus Ng),(u1) = 1. But
u1 is a 2-unit in Q(w) and there is only prime ideal above 2 in ()(w). Therefore u
isin fact a unit and u € H.

Finally, it remains to prove that K (,/7)/k is an abelian extension. As noted
before, this is equivalent to proving that (y — 1) -7 € 2-U x by [Tate 1984,
Proposition IV.1.2]. Now y acts on Uy as —o2. Thus, by the definition of 7 and
the isomorphism between Uy and Z[H], this is equivalent to proving that

(7.21) (o2 + Dk f € 2Z[H].

Claim 9. Let x € Z[H). Then x € 2Z[H] if and only if xey € 2egZ[H] and
xe| € 2e1Z[H].

If x € 2Z[H] then clearly xeg € 2egZ[H] and xe; € 2e1Z[H]. Reciprocally,
assume that xeq = 2egag and xe| = 2eja; with ag, a; € Z[H]. Let a := epag+e1ay.
We have by construction 2a = x € Z[H] and 3a = (3eg)ag + (3ey)a; € Z[H].
Therefore a belongs to Z[ H] and the claim is proved.
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We prove (7.21) using the claim. On one hand, we have
eo(0? + Dicf =2 st o £ € 2e0Z[H].
On the other hand, we have
er(o?+ Dif =2"e (62 + 1) f.

The proof will be complete if we prove that e —e’ > 0. For that we use the following
claim.

Claim 10. |H(T, Ux /Up)| =2°7¢.
Let Uy be the subgroup of elements u € Ug such that u'=%" € Up. We have
(Ug/UrR)" Ug/Ur
NWk/Ur) ~ (N(Ux) Up)/UF
~_Ux . Uk
- NWUk)Ur  NUg)+Ur’

By (7.18), it is enough to prove the following group isomorphism

HYT, Ux/Ur) =

(7.22) U+/(N(Ux) + Up) = Ug /(N(Ux) + Ur).

Since Ug+ N (N(Ug) + Ur) = N(Uk) + Uy, there is a natural injection of the left
side of (7.22) in the right side, induced by the inclusion Ux+ C U}’(. We prove
now that this map is surjective. Let u € UIO(. Thus X := (1 — 7) - it € Ur. Note that
(1—7)-x=2-X.Define y:=Np-it —x € Up and 7 := it — y. We have

1-7)-z=0—-1)-u—1—1)Ng-u+(1—1)-x=Xx—Ngyg-x+2-x=0.
Thus z € Ug+. This proves that it =z + y € Ux+ + Ur. Equation (7.22) follows
and the proof of the claim is finished.

Now by the multiplicativity of the Herbrand quotient and Lemma 5.3, we find
that

Q(T, UK) _ 224_2.

7.23 T.Ux/Up) = =

(7.23) O(T, Uk /Ur) OT. Up)
Therefore e — e’ > 2d —2 > 2. This concludes the proof that K (,/77) is abelian over
k and the proof of the theorem. U

Corollary 7.2. Under the hypothesis of the theorem and assuming that the Stark
unit exists, then it is a square in K if and only if the Stark unit for the extension F [k
and the set S is a square and (e — €') /2 + ¢ — ¢’ > 1, where c is the 2-valuation of
ICly |, ¢ is the 2-valuation of |Cl,| and (Uy : N(Ur)) = 2¢. In particular, ifd > 4
then it is always a square and, in fact, it is a 2¢=3-th power. It is also a square if
d = 3 and the extension K [k is ramified at some finite prime.
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Proof. We use the notations and results of the proof of the theorem. By the
uniqueness statement, the Stark unit, if it exists, is equal to n or one of this conjugate
over F. In particular, the Stark unit is a 2"-th power in K if and only if € 2" - U
By Claim 9 and the construction of 7, this is equivalent to 2¢+1s¢ f € 2" epZ and
20e=/2¢, f € 2" e Z[H].

Now e fZ = ey|Cl;|Z by the definition of f, Claim 8.1 and the discussion
that precedes it. Thus the first condition is equivalent to ¢’ + tg + ¢’ > r. For
r =1, this is equivalent to the fact that the Stark unit for F/k and the set S is a
square by Theorem 5.5 and the discussion that follows (7.20) on the number of
primes in S that are inert in F'/k. For the second condition, recall that e; fZ[H] >~
Fittz(,)((Clx)®') and therefore e f € 2'Z[H], where v is the 2-valuation of the
index (Z[w] : Fittz,)((Cl)¢")). By Claim 8.1 and the computation before it, this
index is equal to |Cl;|/|Cl.|. Therefore the second condition is equivalent to
(e —¢€')/2+4 ¢ — ¢’ > r. This proves the first assertion: the Stark unit for K /k and
S = S(K/k) is a square if and only if the Stark unit for the extension F/k and
the set S is a square and (e — ¢’)/2 4+ ¢ — ¢’ > 1. For the second assertion, we
have ¢/ > d —3 by (5.10) and (e —¢')/2 > d — 1 by Claim 10 and (7.23). Thus
ne 24-3. Uy for d > 4 and we have that the Stark unit is a 24-3_th power if d > 4.
Finally, for d = 3, the condition 2¢~¢)/2¢| f € 2e,Z[H] is always satisfied. Assume
that the extension K/k is ramified at some finite prime. If F/k is also ramified
at some finite prime then the Stark unit for the extension F/k and the set S is a
square by Theorem 5.5. If F/k is unramified at finite primes then any prime ideal
that ramifies in K /k is inert in F/k by (A3). Therefore s > 1 and the Stark unit
for the extension F/k and the set S is a also square by Theorem 5.5. It follows that
the Stark unit for K/k is a square by the first part. This concludes the proof. [

Note that the condition in the case d = 3 is sharp. Indeed let k£ := Q(«), where
o’ +a? —9a — 8 = 0, be the smallest totally real cubic field of class number 3. Let
v1, U2, v3 be the three infinite places of k with v (@) & —3.0791, vy () ~ —0.8785
and v3(a) & 2.9576. Let K be the ray class field of k of modulus Z;v,v3. The
extension K /k is cyclic of order 6, satisfies (A1), (A2) and (A3) with S := (S/k),
and is unramified at finite places. One can check that, if it exists, the corresponding
Stark unit is not a square in K.
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THE SHORT TIME ASYMPTOTICS OF NASH ENTROPY

GuoYI XU

Let (M", g) be a complete Riemannian manifold with Re>—-Kg, H(x, y, )
be the heat kernel on M”, and H = (4rt)~"/?¢~/. Nash entropy is defined
asN(H,t) = [, wn (f H) dp(x) — n/2. We study the asymptotic behavior of
N(H,t)and dN (H, t)/dt as t — 0" and get the asymptotic formulas at ¢ =0.
In the appendix, we get a Hamilton-type upper bound for the Laplacian of
the positive solution to the heat equation on such manifolds, which is itself
interesting.

1. Introduction

On a complete manifold (M", g) with Rc > —Kg, where K > 0 is a constant,
for fixed y € M", it is well known that the heat kernel H (x, y, t) on (M", g) is
unique. We assume H = (4mt)~2e=f . As in [Ni 2004b], Nash entropy is defined
as follows.

Definition 1.1. NH, 0 = | (fH)du(x) — g
Mn

Nash entropy is closely related to W-entropy for the linear heat equation, and
the large time asymptotics of this entropy reflects the volume growth rate of the
manifold; see [Ni 2004a; 2004b; 2010].

In this paper, we study the asymptotic behavior of N(H, t) and dN(H, t)/0t as
t — 0T, and solve Problem 23.36 of [Chow et al. 2010]. More precisely, we prove:

Theorem 1.2. Let (M", g) be a complete Riemannian manifold with Rc > —K g,
where K > 0 is a constant. Then

(1-1) N(H,t)=—-iR)-t+ 0@
and

9
(1-2) o IN(H, )] = —1IR(y) +o(1),

where lim sup,_, O (t3/%)t=3/% is bounded, lim,;_.¢ 0o(1) = 0, and t is small enough.

MSC2010: 35K15, 53C44.
Keywords: Nash entropy, short time asymptotics.
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One motivation to study the short time asymptotics of Nash entropy is Li—Yau—
Perelman type estimates for the heat equation on manifolds with Ricci curvature
bounded from below. Motivated by Perelman’s differential Harnack estimate for
Ricci flow on a closed manifold (M", g) with Rc > 0, Ni [2004a] proved the
following Li—Yau—Perelman type estimate for the heat equation when ¢ > 0:

J&x, .0

(1-3) 2Af(x,y,t)—|Vf(x,y,t)|2+f_n <0,

where H (x, y, t) = (4t)""/?¢~/ is the heat kernel. In fact, (1-3) is also true for
the heat kernel on a complete manifold (M", g) with Rc > 0; see [Chow et al.
2008].

Perelman made the following claim.

Claim 1.3 [Perelman 2002, Remark 9.6]. If (M", g) is a compact Riemannian
manifold, g;;(x,t) evolves according to (g;;); = A;;j(t) and g;j(x,0) = g;;(x),
t € (=T,0]. Define 1 =209/(dt) — A and its conjugate [1* = —3/(dt) — A — %A
(Where A =g /A,J). Consider the fundamental solution u = (— 4rt) 2~ f for
U*, starting as a 8-function at some point (p, 0). Then, for general A;;, the function
@af + f/0)(q.t), where f = f — fM” fu,is of order O(1) for (q,t) near (p,0).

We focus on the special case where the evolving metrics are the static metric.
From Theorem 1.2, it is easy to show that Perelman’s claim in the static metric case
is equivalent to the following claim on compact manifolds:

(1-4) 2Af(x,y,z>—|Vf<x,y,r>|2+M —R(»)+ Ot +d*(x. y)).

If (1-4) is true, it is an improvement of (1-3) when ¢ + d*(x, y) is small enough
and R(y) > 0. But, using the explicit formula (cf. [Grigor’yan 2009, Section 9.2])

324 d*
= @mt)” / hdex ( 4—t—t>
for the heat kernel on a hyperbolic manifold H?, it is easy to check that (1-4) is not
true generally. Hence Claim 1.3 is not generally true for the static metric case on
complete manifolds.

As observed in [Ni 2004b], the integrand of 0 N (H, t)/0t is simply the expression
in Li and Yau’s gradient estimate for the heat kernel multiplied with the heat kernel,
which is —(AIn H + n/(2t))H. Because so far there is no sharp Li—Yau-type
gradient estimate for the heat kernel or solutions to the heat equation on complete
manifolds with Ricci curvature bounded from below by a negative constant, we
hope that (1-2) will be helpful in better understanding this estimate.

On the other hand, in the case where (M", g) is a compact Riemannian manifold,
the short time behavior of the logarithm of the heat kernel has been studied by many
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probabilists. Although the heat kernel H (x, y, #) has an infinite sequence expansion
at t = 0, generally there is no such expansion of In H at t = 0, and the singularity
of In H at t = 0 can have many complicated situations. However, Varadhan [1967]
proved

d*(x, )

1-5 limtinH(x,y, t)=— .
1-5) lim ¢In H(x, y, ) 1

Moreover, using stochastic processes methods, Malliavin and Stroock proved
[1996] that the above equation is preserved while taking the first and second spatial
derivatives on a domain outside of the cut locus. Using analytic methods, (1-5) was
proved for complete Riemannian manifolds by Cheng, Li, and Yau [Cheng et al.
1981]. We hope that Theorem 1.2 will be useful in studying the short time behavior
of the logarithm of the heat kernel on complete manifolds by analytic methods.

The strategy to prove (1-1) is to use the infinite sequence expansion Hy (x, y, t)
of H(x,y,t) att = 0, although generally In Hy does not converge to In H near
t = 0 uniformly. In the integral sense of Definition 1.1, we show there is a uniform
convergence in Lemma 3.1 by using an improved estimate of H — Hy obtained in
Theorem 2.2. The rest of the calculation of the integral of Hy is standard, but, for
completeness, we give the details.

To prove (1-2), because the manifold M" can be noncompact, we need to be
more careful when switching the order of differentiation and integration. A detailed
proof of the validity of the switch is given in the beginning of Section 4. We need an
upper bound of H,/H to verify the above switch. This type of bound is known for
closed manifolds [Hamilton 1993], and in [Chow et al. 2008] (see also [Ni 2006])
the proof is sketched for complete manifolds with Rc > 0 using a strategy similar to
that in [Kotschwar 2007]. A detailed proof of this Hamilton-type upper bound for
complete manifolds with Rc > —K g is included in the appendix for completeness.

The paper is organized as follows. In Section 2, we state some preliminary results
about the heat kernel and get some improved estimates of H — Hy. In Section 3,
we prove (1-1). In Section 4, using (1-1) and results in the appendix, we prove
(1-2). In the appendix, we prove Hamilton-type upper bound of H;/H on complete
manifolds with Ricci curvature bounded from below.

2. Preliminaries

We first define some notations and functions. In the rest of the paper, we fix y € M"

and define o
Qy={xeM":d(x,y) <inj,(»)},

where inj, () denotes the injectivity radius of the metric g at y. Define

B(p) ={x:d(x,y) <p} and B (p)={x:d(x,z2) <p}.
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Hence B(p) = By(p). V(B;(p)) is used to denote the volume of B, (p) and V_k (p)
is the volume of the geodesic ball of radius p in the constant (—K /(n — 1)) sectional
curvature space form.

Fix r € (0, § inj,(y)) and let No =n/2 + 3. Define

_ d*(x, y) ~ _ d*(x, y)
_ n/2 _ n/2
E = (4nt) exp(— @) ) and E = (4nt) exp(— ) )

When the meaning is clear from context, we sometimes simplify notation by
denoting B(r/2) by B and d(x, y) by d.
Assume 7 : [0, 00) — [0, 1] is a C*° cut-off function with

ifs <r,
if s > 2r.

1
2-D n(s) = {0

The following theorem collects several known results about the heat kernel on
complete manifolds; see, for example, [Chow et al. 2010; Garofalo and Lanconelli
1989; Li 2012].

Theorem 2.1. (M", g) is a complete Riemannian manifold with Rc > —K g, where
K > 0 is a constant. Then there exists a unique positive fundamental solution
H(x,y,t) to the heat equation, which is called the heat kernel. Moreover,

H(x,y, 1) € C®(M" x M" x (0, 00))

is symmetric in x and y, and

®
(2-2) . H(x,y, 1)dpu(x) =1,
(i)
(2-3) H(x,y, 1) = Pn(x, y, 1) + Fyy(x, y, 1)

(2_4) PNO(X,y,t)=7"I(d(X, )’))HNO(X yst)
_ d* (x )
(2-5)  Hy,(x,y. 1) = (4m) "/ exp( 4 ) Zwk(x i,
where g (x,y) € C(Ry) and k=0, 1, ..., Ny. Also, Hy, satisfies

ad
2-6) (&= ) Hyo .y 1) = EAgnt™:
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(iii) let {x* }i_, be exponential normal coordinates centered at y € M". Then ¢
and @1 have the asymptotic expansion

(2-7) @o(x, y) = 14+ LRy, (MxPx? + O(d*(x, y)),
R
(2-8) w¢nﬁ=—§9+ouum»

We prove an estimate for Fy,. This estimate is an improvement of the usual
estimate of Fy,, which only gives ¥+1="/2 bound. The improved estimate (2-9)
is the key to the proof of Lemma 3.1.

Theorem 2.2. For Fy,(x,y,t) in Theorem 2.1, we have the following estimates:

d?(x,
(2-9) |FN0(X,y,t)|§CI4CXP<— (;y)),
9 N LRI
(2-10) atFNo(x,y,t)‘§Ct exp( ).

where t is small enough and C is a positive constant independent of x, t.

Remark 2.3. (2-9) was proved in [Garofalo and Lanconelli 1989] for uniformly
parabolic operators. Our proof of (2-9) and (2-10) is motivated by an argument in
[Li 2012] and is different from the proof in [Garofalo and Lanconelli 1989].

Proof. (A). We first prove (2-9). From the definition of Py, (x, y, t), it is easy to
see that lim;_,o Py, (x, y, t) = §,(x). In particular,

(2-11)  Fny(x,y,t) = H(x,y,t) — Pyy(x,y,1)

t
= —/ 9 H(x,z,t —5)Pny(z,y,5)du(z)ds
0 as M)l

:_/of <%_AZ>PN0(Z,y,S)'H(X,Z,[—s)du(z)ds’

where A, is the Laplacian with respect to the variable z.
From (2-6) and the definition of n, when z € B(r),

d*(z,y)
as ’

(2-12) ‘(i - AZ>PN0(Z, s S)‘ <Cs’ exp(— 1
s
and when z € B(2r)\B(r),

(2-13) Ki—mymm%ws@fm”w%

)
ds '

4s
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Hence
(2-14)  |Fn,(x, y, )]

t d2 ,
§C1/ $3 H(x,z,t—s)exp(— @ )
0 B(r)

45

t d2
~|—C2/ s_”/z_I/ H(x,z,t—s)exp(— (@, y))du(z)ds
0 B(2r)\B(r) 4s

) du(z) ds

<(a)+ (b)
We can find 0 < #; <1 and ko > O such that if s € (0, 1),
V(B,(/5)) = kos™/* forany p € B,(3r).

In the rest of the proof, assume ¢ € (0, #;]. We have two cases.

Case 1. If x € B,(3r) and z € B,(2r), then, from [Li and Yau 1986] and the above
volume lower bound,

(2-15) H(x,z,t—s)
-1/2 -1/2 6d*(z, x)
<CV V2B, (N1 =35)V V2(B,(JT—5)) -exp| CK(t —s) — —— =

25(¢ — )
w%am)
25(¢ — )

Case 1l. If x ¢ By(3r) and z € By(2r), using (2-15), d(x, z) > r, and the volume
comparison theorem,

< C(K, ko, n)(t —s)™"/? exp(—

- 1/2
(2-16) H(x,z,1—s)<CV~'(B,(Vi—53))- |:V_K(\/l s+d(x, Z))]

V_k(Vt—s)
6d%(z,
- exp [CK(I—S) — %}
23d%(z,
< C(K, ko, n,r)exp <_W(Z—g)

Note that, in Case L, inj, (x) has a uniform lower bound. Hence it is easy to get

2
(2-17) / 52 exp(—d (Z’x)> du(z) < C
By(r)

100s

for any s € (0, 1;].
Now, using (2-15), (2-16), (2-17) and the classical inequality

d*(x, z) N d*(y,z2) - d*(x,y)
t—s Ky - t

’
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we can get

2 2
H(x,z,1—5) eXP<—d & y)) du(z) < Cexp(——23d . y)>.

By(r) 45 100z
Hence
23d%(x, y)
2-18 <crt ).
(2-18) (a) = eXP( 1001 )
Similarly,

2
/ H(x,z,t—s)exp( @ ”)d ()
B, (2r)\By(r) 4s

3r2 dz(x, y)
ceeo{-2)l-2522)

Hence
(2 19) (b) < C /t 7%71 37"2 d dz(-x’ )’)
- s expl ———— ) ds | exp| —
=2, P\ " T00s P 51
d*(x, y)
4 _ )
<Ct exp( 5 )

By (2-18) and (2-19), (2-9) is proved.
(®). The strategy to prove (2-10) is similar.

. yt)-E[ // (2 -a.) PNO<z,y,s>-H<x,z,z—s)du(z)ds]

f/ (& =) Puey, o) (S HEx 2,1 =) ) du(2) ds

d
+ (A= 2 ) Prg(x vi1)

=(y)+(1)
From (2-12), (2-13), and Py, (x, y,t) =0, when x ¢ B(2r),
2
(2-20) (v) < Ct* exp<—d (;’ Y )).

Now we estimate ().
' d
)= _/0 / n <§ - AZ>PN0(Z’ v,8)- (A, H(x,z,t—s5))du(z)ds

—/Ot/n[AZ<%—AZ>PNO(z,y,s)]-H(x,z,t—S)dM(Z)dS-
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Similarly as with (2-12) and (2-13), from (2-6), when z € B(r),

9 d*(z,y)
@2 A5 - A Pty 9| < Cas exp(—T ,
and when z € B(2r)\B(r),
. 9 123 gy (4@ D)
(2-22) ‘Az<as AZ)PNO(z, y, s)‘ < Cys exp( ).

Following a similar argument as in the proof of (2-9), using (2-21) and (2-22)
instead of (2-12) and (2-13),

2
(2-23) (y) < cr? exp(-d (;ct, y)>‘
From (2-20) and (2-23),
2
%FNO(x’y’t)‘S(V)+(T)§Ct2exp(_d (;ng)) -

3. The short time asymptotics of N(H, t)

From (2-5) and (2-7) in Theorem 2.1, there exists 0 < 7y < 1 such that
d*(x, y)
4¢

holds when x € B(r/2) and 0 < t <ty. In Sections 3 and 4, we assume that ¢ € (0, 7]
and (M", g) and H are from Theorem 2.1.

(3-1) 1< @nn? exp( )HNO(x, y, 1) <2

Lemma 3.1.

(3-2) / [m M} CH(x,y,1)du(x) = 0(t?)
B/l Hny(x,y,1) e '

Proof. Assume x € B(r/2),t <ty. Then Py,(x, y,t) = Hy,(x, y, t). Hence
Fny(x,y,t) =H(x,y,t) — Hy,(x, y, 1).
From (2-9),

d?(x,
(3-3) |Fy, (x, y, 1) < CrNot1=n/2 exp(—ﬂ).

5t
If Fy,(x,y,1) >0,

H F F
In -H(x,y,t)=1n<1+ N°>~H§ Mo g
No Hy, Hy,

2
< CNot! exp(d (x,y)

-H f).
20 ) (x,y,1)
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If Fy,(x,y,t) <0, H(x,y,t) < Hy,(x, y, ) and

In Hx,y,t)=InH(x,y,t) —InHy,(x, y,t)|- H(x, y, 1)
No
= [FUH Gy = Hyy (o, 0] - Hr v,
where H(x,y,t) <& < Hy,(x, y,t). Hence
Fy, d*(x, y)
In 1 < “H = Fy, < CtNoH1=n2 oxp[ - =222 )
No Hi(x,y,1) < ‘ i No = exp <7

By the above,

d*(x,y) d*(x,y)
Hl|(x, v, 1) < Ct*|"/? ’ “H — ’ .
No 6.0 = [ exp( 201 ) +exp< 5t )]

From (3-1) and (3-3),

(3_5) H (X, Yy, t) =< |11N()| “ N()|
dz s dz X,
<2(47.[t)7n/2 ( (xt y)) +Ct4'CXp( ( y)>

5t
By (3-4) and (3-5),

(3-6) In H|(x,y, 1) <Cr*.
No
Hence
H(x,y,t
/ |:ln(x—y):|-H(x,y,t)du(x):O(tz). O
B/l Hno(x,y,1)

Proof of (1-1).
- / FHdu= / (— fH) du+ / (— fH) dp = (D) + (ID.
n M"\B(r/2) B(r/2)

First we estimate (I). From [Li and Yau 1986], we have

2
H(x,y,0) < CVT2B.(D)V (B, (V1) - exp[cm -2 (;C; y)]'

If x € M"\B(r/2) and ¢ is small enough, using the volume comparison theorem,

(3-7) H(x.y. 1) < CV (B, (VD) - Vok(Witd), [CKt—i]

VWD St
—)
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where C depends on n, K, r, and the metric g near y. Choose ¢ small enough such
that H < Cr? < e~ !. Then, by the monotonicity of #(x) =Inx - x on (0, e 1,

In H(x, y, 1) H(x, y,t)|<‘ln[Ct eXp( Céi)] [Cf eXP( ”éf)](

Hence
2
< frponlleren (5] [erten (-5)] aue

4 e [er (=) anco

(3-8) | = '/ [ln H+" ln(47tt)] - H du(x)
"\B(r/2)

<o0@?).

In the last inequality, we used Rc > —K g and the volume comparison theorem.

(11| :/ [lnH-l— ’11n(4m)] Hdpu
B(/2) 2

H
= f In—— . H du(x) +/ [m Hy, +2 1n(471t)] H dp(x)
B(r/2) No B(r/2) 2

= (IIT) + (V).

By Lemma 3.1, (II) = O(#?). From Lemma 3.2, which follows,
n 1 32
(IV)=—§+5R(y)-t+0(t ). O
Lemma 3.2.
(3-9) / [ln Hy,+2 1n(4yrt)] CHdp(x) = -2 + IRy - t4+ 0.
B(r/2) 2 2

Proof. Set (1) := fB(r/Z) [In Hy, 4+ (n/2) In(4r¢t)] - H dju(x). From Theorem 2.1,

) (O
4 +1In (Z goktk>
k=0

d?(x,
In Hy, = —g In(drn) — L&
and
No
ln(z §0ktk) =Ingo+ e t+ 0.
=0 %o

Hence

d*(x,
(I):/ [—M+lnfpo+ﬂ-t+0(t2)]‘Hd,U«(x)-
B(r/2) 41 %o
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Now using Theorem 2.1(iii),

(3-10) (1)=/ [ @ +lzR,,q<y)xf’xq+0(d3)+(ﬂ+0(d))}
B/l 4 6

“Hdu(x)+ 0%
= (I) 4 (III) + (IV) + (V) + (VD) 4 O(#?),

where )
(II)=/ (—d (x’y)) H dp(x),
B(r/2) 41
I = ﬁ/ ” (qu(y)xpxq) -Hdu(x),
(IV) = C / e y)- Hxy, 1) du(o).
B(r/2)
=22 / Hx. y. 1) du(o),
B(r/2)
(VI):Ct-f dx,y)-H(x,y, t)du(x).
B(r/2)
From (3-7),
f H=/ H—/ H=1+0>.
B(r/2) n "\ B(r/2)
Hence

(V) =R -t 4 O().

Using (3-5) and the fact that
[ 0wtz exp(~BL) i = 04,

where k is any nonnegative integer, we can get (IV) = O (3/%) and (V) = 0(13/?).
Similarly,
(II) = 1R(y) -t + O(t?)

Finally, from Lemma 3.3, which follows,
n
(II)=—5+éR(y)-t+0(z3/2). O
Lemma 3.3.

1
G-11) __ d(x, y) - Hdpu(x) = —= + LR(y) -t + 0(*/).
4 I/ 2
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Proof. (Il) := —(1/(4t)) fB(r/Z) d*(x,y)- Hdu(x). Then
1

(3-12) (I) = —— d*(x,y) - (Hy, + Fy,) - a dx,
4t J B2

where dx in the integral of (3-12) is the volume element of Euclidean space R”,
and

a=./det(g) =1— LR, (MxPx+ O(d’(x,y)).
Then

1
M=—— [ d*@x,y) @rxt)y" exp
4t J B2

_[_1_1 . 2 ()12 <_£>
_[ » 24R(y)] /B<r/z>d (P exp(—5 ) dv

2
A1) (R g ()xPx)d? -exp<—i—t) dx + 03

(_d2(x,y)

a7 )((po 4+ @1t) -adx + 0(t2)

4_8t B(r/2)
|
- [—1/4z — 1/24R(y)] 2t 4 2+ 0,

where

n n n
_ 1
I, = - (4mt) n/2 (kg_l Am,f) . ( x,2> exp(—a . ' lsz-) dx.

i=1 Jj=

In the above we diagonalize R, (y) and let Ax = Ry (y).
We can get I} = 12,72 and the induction formula

n
I=1,, +4(Z ki>t2 +4(n+ Dyt

i=1
Then it is easy to get
n
(3-13) I, :4(n+2)<2k,~)t2 =4(n+2)R(y)t>.
i=1

By all the above (II) = —n/2 + (R(y)/6)t + O (t*/?). O

4. The short time asymptotics of dN(H, t) /0t

To study o N (H, t)/dt, we must first switch the order of differentiation with inte-
gration. Because the manifold M”" can be noncompact, we need to be more careful
when doing this. The following lemma justifies this switch in our case.
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Lemma 4.1.

0
(4-1) 8_[ H(—f)d,u(x)] 2/ [H (= )] dp(x).
tLJ M

Proof. Define ¢, (x) = ¢ (d(x, y)/p), where ¢ is defined in the appendix, p > 1is a
constant. Fix # > 0 and define G(x, t) =[H(— f)](x, y, t). For any € > 0, assume
1>1>0(@(f! <0, a similar argument works). Then

‘/ G(x,t+1)—G(x,1)
n l

du) = [ Gigpdutr)

S/ IGz(X,tJerl)—Gt(x,t)ldM(X)+2/ sup |Gy(x, s)[dp(x)
B(p) M"\B(p) s€(t,t+I]

< [ |ZGaatan|aw 12 [ Csup GG dut)
B(p) 071 MM\ B(p) selt,i+l]

<@+ dD.
We first estimate (II). From [Li and Yau 1986], for s € [z, t + 1],

2
(42) Sy z [ 2 ek s €
where C = C(K, n). From Corollary A.10,
4-3 A,
- E(X,S)Z C(K 1)
Jt+
= E:" R I VRGBTV P (B 2) }

= S(omaie ofv (5 (f5) (5 (5)])
When x € M"\ B(p), using the volume comparison theorem,
aa [nlv(5.(3)- v (5:(/3))]
<2/In V(By(\/g))l + ‘m v_K(\/g)) FlInV_g (s +d(x, y))

<C(Ins|+s+d),
where C is independent of p. From (4-2), (4-3), and (4-4),

H; C
(4-5) 7 |9) = —(InH[+ [lns| + 5 +d)
s

when x € M"\ B(p).
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From (4-5), on M"\ B(p),
@6) (= H|.s) < [IInHI+ 2 lincdms)|] - H I, 5)
< [llnH|+glln(4ns)|] "C|H|-s~'(JInH|+|Ins| 45 +d)
< %-H[|1nH|2+|lns|2+s2+d2].

From (4-5) and (4-6), if s € [t, ¢t +1] and x € M"\ B(p),
@-7) 1Gi(x,s)]

|

[Hi + 3| H] 4+ (=) Hil . )

Q

H - (|1nH|-|—|lns|-|—s-|—d)+—|H|+ CH. (In H|> + |Ins|® + s> +d?)

Qh

<=H-(InH|*+|Ins|* + s> +d?),

“

where C is independent of p. We can choose / smooth enough such that (r /) < 2¢.
Then, using (3-7) and (4-7), on x € M"\ B(p),

@8 1G9 =Crexp (L) [|c+2ms - EF 4 nsi 452 1 a?]

§C(t+l)exp(—6(tdj_l)) [ +d* 4 |Int|? +<d2>]

§Ctexp< ldzz) [t + |Inz]? +<d2) ]

Hence, for any € > 0, we can find pg > 1 such that if p > py,

4-9) f (sup [Gix, 9D dutx) <
M

"\B(p) selt,t+l]
On the other hand, because 0 </ < 1,
(4-10) |G (x, 1+ 8D du(x) < / sup
B(p) B(p) selt,i+1]

Choose [ < €/(4C(p)). From (4-9) and (4-10), if p > py,

(@11 ‘/ SO o)~ [ Gugp it
n Mﬂ

It is easy to see from Lemma 4.3 and its proof that

|G (x, )| dp(x) = C(p).

< €.

lim [ G,
p—>00 Jyn
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exists and
4-12) lim Gipp, = / G;.
P—> 00 Mn n
From (4-11) and (4-12), we get our conclusion. O

From results in [Cheng et al. 1981], lim;,otIn H = —d2/4 and the limit is
uniform for any x in B(r). Hence we can assume

d*(x,
tnH(x,y,t)=— (Z y)—l-e(t,x,y).

We sometimes simplify notation by denoting €(¢, x, y) by €. Then
n d?
(4-13) t(—f) = Et In(4rt) — T + €,

where lim,_,¢ €(¢, x, y) = 0, and the limit is uniform for any x in B(r). Without
loss of generality, we can assume that ¢o(x, y) > 1/2 when x € B(r/2).

Lemma 4.2.
(4-14) / E(—f)du(x)=—E+%R(y)'t+0(t),
B(r/2) 2
(4-15) f E(=f)O(d(x,y))du(x) =o0(l),
B(r/2)

where lim,_. g o(t)/t = 0.

Proof.

(4-16) / E(—f)du(x)

(=f)du(x)
fzk o(ﬂk

- / (i_ﬂ,>H< £ due) +o()

%o goo

=/<1+%qu(y)xpxq RO) )H( £)+o@)
B

:_§+(1 +12>R(y)t—l— ! /qu(y)xpxq-H(—f)dM(X)JrO(I)-

In the last equation, we used (1-1).
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We estimate the third term on the right side of (4-16).

=15 | Reu)"x" = fduco)
B

_1
T2

2
=1—12/ qu(y)xpxq-HNO[—d—t+ln(po]-adx+0(t)
B

4-17) @

/ Rpg(n)xPx? - H[ln Hy, + n 1n(47'rt)]du(x)
B 2

4

— _L .42, P44
= 15 BE d” Ry ()xPx%dx +o(t)
_n+2
12

In the last equation above, we used (3-13). From (4-16) and (4-17), we get (4-14).
To prove (4-15), we follow a similar strategy.

R(y)t+o(t).

1
| Eenowanw = [ (— - %t)H(—fm(d) dn () +o(1)
B B N

(0]

:/ HNO[lnHN0+ﬁln(4m)]0(d) dpu(x) + o(1)
. 2

2

:fBE(—i—t+1n<po>0(d)du(x)+o(1):o(l). 0

Lemma 4.3.

[ I = 0,
M™\B
where t < 1 is small enough.
Proof. Similarly as with (4-6), on M"\ B,
c 2 2,2, 12
(4-18) |(—f)H,|§7-H[|lnH| +|Int|*+t+d°].
Hence
c 2, C 2,2, 12
(=) H| < — H-|InH|"+ — H(|Int|* +1*>+d*)
M’l\B t Mn\B t M"\B

= (I) + D).

Similarly as in the proof of (3-8), using (3-7), the volume comparison theorem,
and the monotonicity of 2(x) = x(In x)2, when x € (0, e 2],

M < o@'?).
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Using (2-9), when x € M"\ B,

2

2
_ 112 axn(— 92 444 exn— 2= ]: N
(4 19)H§|17HN0|+|FN0|§C[I exp( 4t>+t exp( 5z> 0()E.

From (4-19), it is easy to get
an < o@). (]
Proof of (1-2).

0

8_[ H(—f)dM(X)] / H + H+( f)Ht]dM(x)
t M"l

:214-/ (- H; du(x)+/ (=f)H;du(x)
MM\ B(r/2) B(3)

From Lemma 43, we have

D = o¢'?).

From Lemma 4.4, which follows, we get

n 1
(II)=—Z+§R(y)+0(1). O

Lemma 4.4.
n 1
fB(—f)Hz dp() = =1+ SRO) +o(l).
Proof. From (2-10) and (4-13),
/B (= ) Hidpu(x) = /B () (Hyp)e + 0(0)
and
fB (= ) (Hyy)r dpu ()
dZ
— [ (=5 Chdueo + | B rdueo +otn)
1
- / Hyy (= N> dp(x) — - / Hyy(— f)dp(x) + f Epi(—f)du(x) +o(1)
A B 2t B B

= (D) + (ID) + (III) + o(1).
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Using Lemma 4.2,

(1) = /B Epr(—f)dux) = 1R(y) /B E(—f)du(x) + /B E(—f)-0(d)
n
=~ RO (D).

From (2-9) and (1-1),

n
Wm=-3 /B Hyy(— f) dpt(x)
__n _ _n No+IN
thBm ) dutx) 2t/30(’ VE(—f) du(x)

= TR+ o)
VTRV

Similarly, by Lemma 4.5, which follows,

1 No+1y 7 2 1 2
(I)Z—/(H+0(t TIEX=f)-d du(X)Zm/BH(—f)-d dp(x) +o(1)

n(n+2)
4 (5 3) RO o).

From all the above,

n 1
/B () Hidiu(x) = =3+ SRO) + o) 0
Lemma 4.5.
) n(n+2)
31 [ HED Pt = =" (54 RO + o),

Proof. We use a strategy similar to that used in the proof of (1-1).

/ H(=f) - ddu(x)

412
1 H
L n 2 L 2
[ln Hy, + > 1n(47rt)]Hd du(x)+ 2 /;;[ln HNO}Hd du(x).

42

From (3-6),

[m IZ/JH — 0(h.
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Hence,

f H(=f) - d*dp(x)

42
! / d2+1 + 8 0 |HE - adx+o(1)
=— ——+In — -adx+o
4t2 B 4t (PO ()
1 1 1 R(y) 1
- 4L Pyd 4 = _ Vg2 Pyd . g2
4:2/3( a7 T Rea WXt RO = = md™ gy Roa )P d)
-Ed?dx + o(1)
nn+2) —-n*4+2n+4 f 4
=— R ER Pxd.d*d D).
w24 W+ 79253 Jo, ERpa 0T didr+ o)
Define
n n
Qn:/ Equ(y)xpxq-d4dx=/ E(ZA,x?)( xf)dx
Rn R~ im1 le

where we diagonalize R, (y) and let A; = R;;(y). We can get Q| = 120173 and
the induction formula

On=0,_1+82n+5) (Z A,-)ﬁ + 8> +4n+3)r, 1.

i=1
Then it is easy to get O, = 8(n%+6n + 8)R(y) - 3. Hence

nn-+2) +(
3

fH( @ dueo ="

e >R(y)+0(1) O

Appendix

Richard Hamilton [1993] established an upper bound of the Laplacian of the positive
solution to the heat equation on closed manifolds. We generalize his theorem to
complete manifolds with Ricci curvature bounded below. Our proof follows a
strategy similar to that in [Kotschwar 2007]. We firstly establish a preliminary
estimate on f|Au| so that the maximum principle of Ni and Tam [2004] may be
applied to the quantity of interest in Hamilton’s second derivative estimate.

We introduce a cut-off function ¢ defined on R, which is a smooth nonnegative
nonincreasing function which is 1 on (—oo, 1) and 0 on [2, +00). We can further
assume

16.

2
(A-1) $l1<2 16"+ (¢¢)

To prove the following Bernstein-type local estimate, we employ a technique of
W.-X. Shi [1989] from the estimation of derivatives of curvature under the Ricci
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flow (see also [Chow et al. 2008]). Define F = (C + t|Vu|?)t*| Au|? and consider
the evolution of F.

Lemma A.6. Suppose (M", g) is a complete Riemannian manifold. If u(x, t)] <M
is a solution to the heat equation on B,(4p) x [0, T for some p € M", constants
M, p,T,K >0,and Rc > —Kg on B,(4p),

(A-2) 1]Aul <Cn, K, Jl/t)[l n T(l + %)] : (% + 1) - [T +coth< an)]

holds on B,(p) x [0, T].

Proof. From [Kotschwar 2007], we get that

(A-3) tIVu|2§C1[1+T(1+%>] — G,

holds on B, (2p) x [0, T'], where Cy = C (K, J). Define C3 = 4C>, and
F(x,t) = (C3+1|Vu(x, )13 Au(x, )]

A long but straightforward computation gives

9
(5 —2)F
= —2(C3+t|Vul)|VAul> =8> Y "V, V;uV; AuVudu — 263 |V2ul* - | Aul?
i’j
+21(Cs5 + t|Vul») | Aul? + [|Vul|? = 2t Re(Vu, Vu)lt?| Aul’.

When x € B,,(4p), using t|Vu|> < C = C3 and Re > —Kg,
(% _ A)F < —1063|Vul? - |VAul? + 83 |Vul - |V Aul - |V2u| - | Aul
—283|\V2ul? - |Aul? + Cat|Aul?
< =3°1V2ul? - | Aul® + Car| Aul?,

where C4y = 2KT + 11)C,. The term with the coefficient —% arose from the
inequality —10x% +8xy —2y? < —%yz. On the other hand, we know that |V?u|> >

(1/n)|Au|*. Hence

0 2 3 4 2 L L Cs o

——A>F<——t Aul*+Cat|Au)? < ——[2|A T Cy<—-2F

(5p=8)F == Plaul+CarlAuP = = [P AuPP+ T Co < == F+

In the last equality we used F < (Cz + C)1?|Aul? = 5C,t?| Aul?, and

Cs
=

(A-4) C5=C(n,K,A/L)(1+T)[1+T(1+#)],

(A-5) C6:C(n,K,Ji/t)[1+T<l—i—#)]2.
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Define y (x) = ¢ (d(x, p)/p). Then y (x)F(x, t) attains its maximum at a point
(x0, 10) € B,(2p) x [0, T]. The rest of the computation is at (xo, f);

0 C c
0< (E—A)(VF) < y(—TéFerTS) —Ay-F —2VyVF.
Note that at (xg, fp), V(y F) = 0. Letting G = (v F) (xg, tp), we get
C vyl? c
(A-6) 05——662+<2ﬂ—Ay>G+—5
t y t
and

2 72 " /
<2|W| _Ay> 2T 8 i p)
A p= 9 pT P

32 2
§—2+—-Coth< K ,0).
P p n—1

In the last inequality we used (A-1), Rc > —Kg, and the Laplacian comparison
theorem. From (A-4)—(A-7),

) N T ] K
0<—G —i—C(n,K,JM,)[1+T(1+P)] T-[p—l—;coth( —1,0>]G

+C K, Jt/t)[l + T(l + %)]3(1 7).

Then it is easy to get

G5C(n,K,A/L)-[H—T(H—%)]2(1+T)-[(#—i—%)coth(\/gp)%—l%—T(H—%)].

Hence, on B, (p),

Plau? <Cy'F<Cy'G

< C(n,K,./I/L)-[l-i—T(l—i—%)]z- [(%H) (T +coth( n%p)) +1]

Taking the square root in the above inequality, we get our conclusion. ([
Letting p — oo, we get the following global estimate.

Corollary A.7. Suppose (M", g) is a complete Riemannian manifold with Rc >
—Kg,and |u(x, t)| <M is a solution to the heat equation on M" x [0, T], where
K, M, T are positive constants. Then

(A-8) t|Aul < C(n, K, M)(1+T)?
holds on M x [0, T].
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We also need a maximum principle, due originally to Karp and Li [1982], which
was stated more generally by Ni and Tam.

Theorem A.8 [Ni and Tam 2004, Theorem 1.2]. Suppose (M", g) is a complete
Riemannian manifold and h(x, t) is a smooth function on M" x [0, T| such that

(&-a)ren=o

whenever f(x,t) > 0. Assume that

T
/ / e_“'dz(x’p)ff(x, $)du(x)ds < oo
O n

for some a > 0, where p is a fixed point on M" and f,(x,t) := max{f(x,1t),0}. If
f(x,0)<0forallx e M", f(x,t) <O0forall (x,t) e M" x [0, T].

Now we are ready to prove Hamilton’s theorem in the complete case.

Theorem A.9. Suppose (M", g) is a complete Riemannian manifold with Rc >
—Kg,and 0 < u(x,t) <.l is a solution to the heat equation on M" x [0, T'], where
K, M, T are positive constants. Then

2
(A-9) t(M+@)gn+(4+2Im1nﬂ
u u u
Proof. Defining u. = u + € for € > 0, we obtain a solution satisfying € < u, <
M+ € =: M. Once the estimate has been proved for u., the theorem follows by
letting € — 0. Consider the function

Vu,|? M,
F(x,1) :t<Au€+ Vel ) —u€|:n+(4+2Kt)ln—e].
Ue Ue

A long but straightforward computation gives

(A-10) (% _ A)F(x, 1) = u€|:—2t|V2 nuc?+ Alnu — 2+ 2K0)|V Inu, >
—2tRe(VInu,,Vinu,) —2K In J;k]
€

< ue[—%MInuelz—i—AInue —2|Vlnu€|2].
If F(x,t) >0 at (x, 1),
(A-11) —2|Vlnu€|2§Alnu€—’;.
From (A-10) and (A-11),
0 n

(A-12) (E — A)F(x, 1< ue[—%|Alnue|2+2A Inu, — ?] < .
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In (A-3) let p — o0. Then
(A-13) t|\Vul> < C(K, M, T).
From (A-13) and (A-8),
Vu 2\ 1?
ﬂ)] <Cle,n, K, M., T).

Ue

(A-14) Fi(x, 1)< [z(Aue +

Using (A-14), for any p € M" and p > 0,

T
(A-15) f/ exp (—d*(x, p))F(x,t)du(x)dt
0 JB,y(p)

<C(e,n, K, Mk, T)/ exp (—d*(x, p))du(x) < C.
Mn

In the last equality we used the volume comparison theorem and Rc > — K g. Letting
L — 00,

T
(A-16) / / exp—d*(x, p)Fi(x,t)du(x)dt < C < oo.
0 n

From (A-12) and (A-16), using Theorem A.8, we get F(x,t) <Oforall0 <t <T,
completing the proof. ([

We now give an the upper bound for the Laplacian of the heat kernel.

Corollary A.10. Suppose (M", g) is a complete Riemannian manifold such that
Rc > —Kg, H(x, y,t) is the heat kernel on M", and 0 <t < T, where K, T are
positive constants. Then

AH+ VHP ( 1)
I X, Y,

<—2H(x’y’t){ +(4+Knl CK.T) }
= " YHGy. OVIRB (T2 VB2 |

Proof. Note that if s € [t/2, t], from [Li and Yau 1986],

Hix, 3.0 < COLT) -V (B(iTD) V2B, (i72)

Then apply Theorem A.9 on u(x,s) = H(x,y,s +1t/2) and M" x [0, ¢t/2]. The
conclusion follows from (A-9). O
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SEVERAL SPLITTING CRITERIA FOR
VECTOR BUNDLES AND REFLEXIVE SHEAVES

STEPHEN S.-T. YAU AND FEI YE

In this paper, we show two splitting criteria for vector bundles on complex
projective spaces by analytic method. We also prove a splitting criterion for
reflexive sheaves on Horrocks schemes by algebraic method.

1. Introduction

Vector bundles are favored objects studied in algebraic geometry and commutative
algebra. We say that a vector bundle splits if it is isomorphic to a direct sum of line
bundles. A very interesting problem is whether there are nonsplitting vector bundles
of small ranks on complex projective spaces. Although such vector bundles exist in
lower dimensions, they seem to be extremely rare as the dimension increases. In
fact, Hartshorne conjectured:

Conjecture 1.1 [Hartshorne 1974]. If n > 7, all rank-2 vector bundles on the
projective space P split.

Under some additional conditions, the conjecture was proved. However, the
conjecture is still open. The most well-known condition is the vanishing of certain
intermediate (local) cohomology groups. The first splitting criterion of this type is
attributed to Horrocks.

Theorem 1.2 [Horrocks 1964]. Let E be a vector bundle on the projective space P"
with n > 2. Then E splits if and only if H'(P", E(k)) = 0 for all k € Z and
l1<i<n-1

A standard proof is to apply induction to n and use the following so-called
“restriction criterion”.

Theorem 1.3. Let E be a rank-r vector bundle over P, with n > 3. E splits if and
only if its restriction E|g to some hyperplane H = P"~! ¢ P" splits.

The first author gratefully acknowledges the support from the National Nature Science Foundation of

China (Grant No. 31271408) and Tsinghua University.

MSC2010: 14F05, 14J60, 32L10.

Keywords: holomorphic vector bundles, connection, reflexive sheaves, Horrocks scheme, splitting
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Evans and Griffith improved Horrocks’ criterion in the 1980’s.

Theorem 1.4 [Evans and Griffith 1981]. Let E be a vector bundle on the projective
space P" of rank r < n. Then E splits if and only if H (P", E(k)) =0 forallk € Z
andl1 <i<r-—1.

Kumar, Peterson and Rao obtained another improvement of Horrocks’ theorem.

Theorem 1.5 [Kumar et al. 2003]. Let E be a vector bundle on P". If rank E <
2[n/2], then E splits if and only if H' (P", E(k)) =0 forallk e Zand 1 <i <n—1.

Another type of splitting criteria involves extensibility of vector bundles. Let X
be an algebraic variety and Y be a subvariety of X. A vector bundle £ on Y is said
to extend to X if there exists a vector bundle F' on X such that F|y = E. Barth and
van de Ven [1974] showed that a rank-2 vector bundle E on P" splits if and only
if E extends to PV for all N > n. Their result was generalized to vector bundles of
arbitrary rank by Sato [1977].

For any coherent sheaf %, we denote the dual by #* = #om(%, Ox). The next
theorem combines extensibility and vanishing of cohomology groups.

Theorem 1.6 [Kempf 1990]. Let E be a vector bundle on the projective space P"
with n > 2 and E* be its dual. Then E splits if and only if the following two
conditions are satisfied:

(1) E extends to P"*1,
(2) H'(P", E ® E*(—k)) = 0 for all positive integer k.

Proofs of the above mentioned theorems are all algebraic. However, the following
remarkable criterion uses an analytic method.

Theorem 1.7 [Luk and Yau 1993]. Let E be a holomorphic vector bundle on CP"
with n > 2 and E* be its dual. Then E splits if and only if H'(CP", E ® E*(k))
vanish for all k € Z.

In this paper, we employ Luk and Yau’s idea to provide analytic proofs of some
splitting criteria of vector bundles on complex projective spaces.

Let p : CP"*!\ {£€} — CIP" be the projection from a point & € CP"*'\ CP". We
prove the following theorems in this paper.

Theorem A. A holomorphic vector bundle E on CP" splits if and only if p*E

extends to a vector bundle on CP" !,

Theorem B. Let E be a holomorphic vector bundle on CP". Ifrank E < 2[n/2],
then E splits if and only if the local cohomology groups H {’é}(ﬂj’”“, E(k)) =0 for
allk € Z and 1 < i < n, where E is the extension of p*E on CP"*!.

Kumar observed that condition (2) in Theorem 1.6 implies that p* E extends to
a vector bundle on CP"!. Thus Theorem A implies the following theorem.
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Theorem 1.8 [Kumar 2003]. Let E be a holomorphic vector bundle on CP" with
n > 2 and E* be its dual. Then E splits if and only if H'(CP", E ® E*(—k)) =0
for all positive integer k.

On the other hand, generalizations of splitting criteria to reflexive sheaves and
more general varieties have been obtained. Abe and Yoshinaga [2008] generalized
the restriction criterion for reflexive sheaves on projective spaces. On the other
hand, Bakhtary [2011] generalized the restriction criterion to Horrocks varieties.

Definition 1.9. A coherent sheaf & on X is reflexive if % = %**, It is normal if
for every open set U C X and every closed subset Y C U of codimension > 2, the
restriction map F(U) — F(U \ Y) is bijective. We define the singular locus of F
as Sing(¥F) := {x € X | ¥, is not locally free}.

Definition 1.10. An algebraic variety X is called a splitting variety if H' (X, L) =0
for any line bundle L on X. A Horrocks variety is a splitting variety X with
H?(X, L) =0 for any line bundle L on X.

In this paper, we prove a generalization of both the theorem of Bakhtary and the
theorem of Abe and Yoshinaga.

Theorem C. Let H be an effective ample divisor on a smooth projective variety X
of dimension dim X > 4. Assume that X is a Horrocks variety. Then a reflexive
sheaf & on X is splitting if and only if the restriction F|y is splitting.

Theorems A and B will be proved in Section 2 and Theorem C will be proved in
the last section.

2. Splitting criteria via connections

Let E be a rank-r complex vector bundle over a complex n-dimensional manifold M.
Denote by «49 and #7(E) the sheaves of smooth g-forms on M and smooth g-forms
on M with coefficients in E respectively.

Definition 2.1. A connection on E is a C-linear morphism
D: d%E) — ' (E)
such that for any open subset U of M

D(fy)=df ®y + fD(y),
for any f € I'(U, %) and y € (U, A°(E)).

A connection D of a vector bundle E localized over any open subset U is
determined by a matrix w = (w'j‘. ) of smooth 1-forms, called a connection matrix
of D over U. It is well known that if the complex vector bundle E is holomorphic,
then we have a connection D which can be decomposed into D’ + 3 such that
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D : ACO(E) > 4TO(E) and § : 4OV (E) - AOD(E), where 4P? (E) are
the sheaves of smooth (p, ¢)-forms with coefficients in E.

Definition 2.2. Let E be a holomorphic vector bundle over C"*! \ {0} with a
connection D = D’ 4 3. Denote by (27:0 0{; dz j) the connection matrix of D". We
say D is holomorphic in the direction z; for some 0 </ <n if the 91.]‘, are holomorphic
foralll <i,k<r.

Theorem 2.8 of [Luk and Yau 1993] says that the existence of such a connection
will force the cohomology groups H'(C"*!\ {0}, E) to vanish for 0 < i < n. To
prove our theorems, we will look for such a connection.

Let L be the line in C"*2 defined by zo=z;=---=z,=0and £ =[0, ..., 0, 1]
be a point in CP"™!'\ CP". Set X = C"*2\ L and U = CP"*!\ {¢}. Consider
the projections 7 : X — U, w((zo, - - -, Zn+1)) = [205 - -+ » Zn+1] and p : U — CP",
p([20s - - -» Zns1]) = [20s - .., 2n]. It is well known that p defines a line bundle
structure on U. In fact, U is the total space of the line bundle O¢pn (1).

Assume that E is a holomorphic vector bundle on CP". We claim that 7*p*E
has a connection which is holomorphic in the direction z,,1. Let D = D' + 0
be a connection on E. Assume that D’ has a connection matrix o' = (wg) over
U; = {z; # 0} c CP", and wf = Z'}:O 05, d(z;/z;). Pulling back E and the
connection D to X, we see that 7*p*E admits a connection whose D’-part is
defined by the connection matrix

n n
1 Zj
(X g0p0mae = Y60 pom sz )
Zi = (zi)

j=0
which is clearly holomorphic in the direction z, 1.

Now we are ready to prove Theorems A and B. The next result is a special case
of Lemma 2.2 in [Luk and Yau 1993].

+00
Lemma 2.3. H (X, m*p*E)y= @ H'(U, p*E(k)).
k=—00
Proof. Notice that the projection 7 : X — U admits a bundle structure whose fibers
are the punctured complex line C*. In fact, one can check that X is the total space
of Oy (1) with the zero section U removed. Applying Lemma 2.2 of [Luk and Yau
1993], we get the equality. ([

Denote by ¢ : CP"*!\ {€} < CP"*! the inclusion and E =, p*E the extension
of E. The following proposition is the key to prove Theorems A and B.

Proposition 2.4. Assume that the local cohomology groups
Higy (CP"! E(k) = Hgy (CP" E(k)) =0,

or <l <nandaa (SY/ en / ,7Tp = or <i<n.
0<i dallk € Z. Then H (X, 7* p*E) = 0 for 0
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Proof. By the assumption and the exact sequence of local cohomology

H{, (CP"™! E(k)) - H'(CP"*', E(k))
— H\(U, p*E(k)) — H’“(CIP”“ E(k)),

we see that . .
H'(U, p*E(k)) = H (CP"™, E(k)).

Hence H' (U, p*E(k)) is of finite dimension. By Serre vanishing theorem, there
exists an integer N such that H’ (CP”+1, E(—k)) =0 for all integers i, k with |k| > N
and 1 <i < n. Therefore there are only finitely many H' (U, p* E(—k)) # 0. Thus
Hi(X,n*p*E) = EB,](V:_N H' (U, p*E(—k)) is of finite dimension by Lemma 2.3.

We know that 7* p* E admits a connection which is holomorphic in the direc-
tion z,+1. Applying the same argument as in the proof of Theorem 2.8 in [Luk and
Yau 1993], we conclude that H (X, n*p*E) = 0. O

Theorem A follows very easily from Proposition 2.4.

Theorem A. Let E be a holomorphic vector bundle on CP". Then E splits if and
only if p*E extends to a vector bundle on CP"+!.

Proof. Assume that E = @, Ocpr(a). Then p*(%[pn (a) extends uniquely to
@CPnJrl (a). Hence E is a vector bundle, moreover E splits. Conversely, assume
that E is a vector bundle, then depth,, E= depth E +=dim 0, =n+1. By [Hartshorne
1967, Proposition 1.4 and Theorem 3.8], we know that ng}(CIP"H, E( k)) =
O for all k € Z and i < n. By Proposition 2.4 and Lemma 2.3, we see that
H! (U, p*E(—k)) =0forall k€ Z and 1 <i <n. Hence H' (CP"*!, E(—k)) =0
forall k € Zand 1 <i < n. It follows from Theorem 1.2 that E splits, and so
does E. ([l

Another consequence of Proposition 2.4 is the following local cohomology
version of Theorem 1.5 of Kumar, Peterson and Rao.

Theorem B. Let E be a vector bundle on CP". If rank E < 2[n/2], then E
splits if and only if for all k € Z and 1 < i < n the local cohomology groups
H{,(CP"*, E(k) = 0.

Proof. 1t is clear that if E splits then H ! (CP”+1 E (k)) =0 for all k € Z and
1 <i < n. Assume that H’ (CP"+1 E(k)) =0forallkeZand 1 <i <n. By
Proposition 2.4,

H (X, 7*p*E)= @ H'(U. p*E(—k)) =0
k=—00
for 2 <i <n—2. In particular, H (U, p*E) = @[ >° ., H (CP", E(—k)) = 0 for
2 <i <n—2. By Theorem 1.5, we see that E splits. O
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Another local version of Theorem 1.5 was obtained as one of the main theorems
in [Majidi-Zolbanin 2005].

3. Splitting of reflexive sheaves

The proof of Theorem C relies on the following two propositions.

Proposition 3.1. Let F be a reflexive sheaf on a smooth projective variety X and H
be an effective ample divisor X. Assume that H is a splitting variety. If F|y splits
into a direct sum of line bundles, then

H'(X,F(kH)) =0 forall keZ.
Proof. By assumption, we have a surjective morphism
(%) H'(X,F((k— DHH)) - H' (X, F(kH)) — 0.

By Serre duality, H' (X, F(kH)) = Hom(Ext"~!(F(kH), wx), k). It suffices to
show that Ext""'(F(kH), wx) = 0 for k <« 0. Consider the spectral sequence of
local and global Ext functors

Ey? = HP(X, &xt!(F, wy)) = EPT = ExtP*(F, wy).

Since |y is free, then Sing(%|y) = &, which implies that Sing(¥) N H = &.
Note that the singular locus Sing(%) is a closed subset of X and H is ample. If
dim Sing(%) =d > 0, then Sing(%)- H%>0.In particular, Sing(%)NH # &. There-
fore, dim Sing(%) =0. Since a coherent sheaf ¥ is free at a point p € X if and only if
the stalk (€xt?(%F, 9)), = Ext(¥F,, §,) =0 for all ¢ > 0 and any coherent sheaf 4,
we see that dim Supp(éxt? (¥, wx)) =0 for g > 0. Hence, H? (X, €xt (¥, wx)) =0
for p > 0 and ¢ > 0. Now there are only two E%-terms H(X, éxt" Y (F, wy))
and H"~!(X, #om(%, wx)) which may contribute to Ext"~! (¥, wy). Since F is
reflexive, then depth, & > 2 for all x € X by [Hartshorne 1980, Proposition 1.3].
Thus H},,(%,) = 0. By local duality, we get €xt"~(F, wx x) = H,(F,) = 0.
Hence éxt"~! (%, wy) = 0. The spectral sequence then tells us that there is a
surjective morphism

(%) H" (X, #om(F, wyx)) — Ext" " Y(F, wy).

Since H" (X, F*(—kH) ® wyx) = 0 for —k > 0 by Serre vanishing theorem,
replacing & by F(kH) in (xx), we conclude that

Ext" N (F(kH),wx) =0 forall k «0. ]

Theorem 3.2. Let € be a vector bundle and F be a reflexive sheaf over a smooth

projective variety X of dimension dim X > 4. Let H be an effective ample divisor
on X. If Fly = €|y and H' (X, €¢* @ F(—H)) =0, then F = €.
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Proof. By the assumption, we see that #om(€, F) = €* Q@ % is also reflexive. Since
a reflexive sheaf is torsion free, then the following sequence is exact:

0> € QRF(—H)—>EQRF —> (€"9F) |y — 0.

Since H'(X,¢* @ F(—H)) =0, then H)(X,¢* ® ) — H(H, (€* Q@ F)|x) is
surjective. Note that Hom(€, &) = H 0(X, #om(€, F)). Therefore, there is a mor-
phism ¢ : € — & extending the isomorphism ¢ : €|y — &|p. We need to show that ¢
is an isomorphism. Consider det ¢ : det € — det %. Since €|y = F|y and Pic(X) =
Pic(H) by Grothendieck—Lefschetz theorem, we conclude that det€ =0x (c1(€)) =
Ox(c1(%F)) = detF. Therefore dety € HO(X, det€* ® det F) = C because a re-
flexive rank-1 sheaf is a line bundle (see [Okonek et al. 1980, Lemma 1.1.15]).
Clearly, det¢ is a nonzero constant, since det¢ is a nonzero constant. Thus at
each x € X \ (Sing(€¢* ® %)), the morphism ¢, is an isomorphism. Since €* ® F
is reflexive, then codim(Sing(¢* ® %)) > 3 and hence ¢ is an isomorphism by
[Hartshorne 1980, Proposition 1.6]. O

Theorem C follows easily from Proposition 3.1 and Theorem 3.2.

Theorem C. Let H be an effective ample divisor on a smooth projective variety X
of dimension dim X > 4. Assume that X is a Horrocks variety. Then a reflexive
sheaf F on X is splitting if and only if the restriction F|y is splitting.

Proof. By [Bakhtary 2011, Proposition 4.13], X is Horrocks if and only if X and all
effective ample divisors are splitting. Clearly, if & is splitting, then %|y is splitting.
Conversely, assume that F|g is splitting. By Grothendieck—Lefschetz theorem,
there is a splitting vector bundle € on X such that €|y = %|y. By Proposition 3.1,
we know that H' (X, €* ® #(—H)) = 0. Therefore, € = % by Theorem 3.2. [

In [Abe and Yoshinaga 2008], the authors also generalized Horrocks cohomology
criterion for reflexive sheaves on projective spaces. However, Horrocks cohomology
criterion may not hold on Horrocks varieties in general. There exist smooth hyper-
surfaces in P> with nonsplit vector bundles satisfying the Horrocks cohomology
condition (see Remarks in the introduction of [Kumar et al. 2007]). It will be
very interesting to know under what cohomology conditions a vector bundle on a
Horrocks variety splits.
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THE MINIMAL VOLUME ORIENTABLE HYPERBOLIC
3-MANIFOLD WITH 4 CUSPS

KEN’ICHI YOSHIDA

We prove that the 8; link complement is the minimal volume orientable
hyperbolic manifold with 4 cusps. Its volume is twice the volume Vg of the
ideal regular octahedron; that is, 7.32 . .. = 2Vg. The proof relies on Agol’s
argument used to determine the minimal volume hyperbolic 3-manifolds
with 2 cusps. We also need to estimate the volume of a hyperbolic 3-manifold
with totally geodesic boundary which contains an essential surface with non-
separating boundary.

1. Introduction

The volumes of hyperbolic 3-manifolds are known to be topological invariants. The
structure of the set of the volumes of hyperbolic 3-manifolds is known.

Theorem 1.1 (Jgrgensen and Thurston’s; see [Benedetti and Petronio 1992, Corol-
laries E.7.1 and E.7.5]). The set of the volumes of orientable hyperbolic 3-manifolds
is a well-ordered set of the type w® with respect to the order of R. The volume of
an orientable hyperbolic 3-manifold with n cusps corresponds to an n-fold limit
ordinal.

This theorem gives rise to the problem of determining the minimal volume
orientable hyperbolic 3-manifolds with n cusps. The answers are known in the
cases where 0 <n < 2.

¢ In the case where n = 0 (closed manifold),
Gabai, Meyerhoff and Milley [2009] showed that the Weeks manifold has
the minimal volume. Its volume is 0.94. ...

e In the case where n =1,
Cao and Meyerhoff [2001] showed that the figure-eight knot complement
and the manifold obtained by the (5, 1)-Dehn surgery from the Whitehead link

This research is supported by Global COE Program “New Development in Mathematics” from the
Ministry of Education, Culture, Sports, Science and Technology (MEXT) of Japan.

MSC2010: 5TM27.
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Figure 1. The 8;' link and a link whose complement is homeomor-
phic to that of the 85 link.

complement have the minimal volume. Their volume is 2.02 ... = 2V3, where
Vs is the volume of the ideal regular tetrahedron.

o In the case where n = 2,

Agol [2010] showed that the (—2, 3, 8)-pretzel link complement and the
Whitehead link complement have the minimal volume. Their volume is
3.66...=4 Z,fio(—l)k/(Zk + 1)? = Vg, where Vj is the volume of the ideal
regular octahedron.

In the case where n > 3, Adams [1988] showed that the volume of an n-cusped
hyperbolic 3-manifold is not less than nV3. Agol [2010] conjectured the following:

« In the case where 3 <n <10,
the minimally twisted hyperbolic chain link complement has the minimal
volume.

¢ In the case where n > 11,
the (n — 1)-fold covering of Whitehead link complement has the minimal
volume.

In this paper, we prove this conjecture in the case where n = 4.

Theorem 1.2. The minimal volume orientable hyperbolic 3-manifold with 4 cusps
is homeomorphic to the 83’ link complement. Its volume is 7.32...=2Vj.

We remark that this link is not the unique one to determine the complement. For
example, the complement of the link on the right of Figure 1 is homeomorphic to
the 8‘2l link complement.

We will prove Theorem 1.2 in Sections 4 and 5. The proof owes much to Agol
[2010].

2. Review of Agol’s argument

In this section, we set up some notation and review the argument used by Agol
[2010] to determine the minimal volume of 2-cusped hyperbolic 3-manifolds. We
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treat compact smooth 3-manifolds with boundary and corners. We only consider
surfaces in a compact 3-manifold which are properly embedded or contained in the
boundary. Let I = [0, 1].

Let M be a 3-manifold with boundary. For a properly embedded surface X C M,
let M \\ X denote the path-metric closure of M — X. We will say that X is essential
if X is incompressible and d-incompressible and has no component parallel to the
boundary. Essential surfaces are not assumed to be connected.

A finite volume orientable hyperbolic 3-manifold can be the interior of a compact
3-manifold with the boundary which consists of tori. Its boundary component is
called a cusp. When we say a hyperbolic manifold in what follows, it often means
this compact manifold. We also consider hyperbolic manifolds with totally geodesic
boundary. In this case there may be annular cusps which adjoin the totally geodesic
boundary. The double of a hyperbolic manifold M with totally geodesic boundary
is the manifold obtained from two copies of M by gluing along the totally geodesic
boundary. Then two annular cusps form one torus cusp in its double.

We introduce the notion of pared manifolds. It was defined by Thurston to
characterize a topological property of geometrically finite hyperbolic manifolds.

Definition 2.1 [Thurston 1986, Section 7; Morgan 1984, Definition 4.8]. A pared
manifold is a pair (M, P) such that

e M is a compact orientable irreducible 3-manifold,
e P C dM is a union of annuli and tori which are incompressible in M,

« every abelian, noncyclic subgroup of 7; (M) is peripheral with respect to P
(that is, conjugate to a subgroup of the fundamental group of a component of
P), and

e every map ¢: (S! x I, S! x 31) — (M, P) which induces injective maps on
the fundamental groups deforms, as maps of pairs, into P.

We call P the parabolic locus of the pared manifold (M, P), and an annular
component of P is called a pared annulus. We denote the surface 0 M — int(P) by
oM.

Let (M, P) be a pared manifold. If every map v : (S'x1,8'xdI)— (M, doM)
that induces injective maps on the fundamental groups deforms either into dgM or
into P, then we call (M, P) acylindrical.

Since a finite volume orientable hyperbolic 3-manifold is atoroidal, it is a pared
manifold by letting its parabolic locus be the cusp tori. Conversely:

Theorem 2.2. Let (M, P) be an acylindrical Haken pared manifold, and assume
that dM is incompressible. We assume that M is not a 3-ball, a T? x I or a solid
torus. Then M — P admits a finite volume hyperbolic structure with totally geodesic
boundary dgM. This hyperbolic structure is unique up to isometry.
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Since the double DM of an acylindrical pared manifold (M, P) is atoroidal,
DM admits a finite volume hyperbolic structure, where DM is obtained from two
copies of M by gluing along dpM. Then the diffeomorphism swapping the two
copies of M can be taken to be an isometry. The fixed point set dgM is totally
geodesic [Leininger 2006, Lemma 2.6].

When a hyperbolic manifold is cut along an essential surface, the obtained
manifold is a pared manifold.

Lemma 2.3 [Agol 2010, Lemma 3.2]. Let M be a finite volume orientable hy-
perbolic 3-manifold, and dM be the parabolic locus P of M. Let X C M be an
essential surface. Then (M \\ X, P \\ 0X) is a pared manifold.

Theorem 2.4 (JSJ decomposition for a pared manifold; see [Jaco and Shalen 1979;
Johannson 1979; Morgan 1984, Section 11]). Let (M, P) be a pared manifold such
that 0gM is incompressible. There is a canonical set of essential annuli (A, dA) C
(M, 0gM) called the characteristic annuli. It is characterized up to isotopy by the
property that they are the maximal collection of nonparallel essential annuli such
that every other essential annulus (B, dB) C (M, dgM) may be relatively isotoped
to an annulus (B', dB") C (M, dgM) so that B'N A = &. Then each complementary
component (L, dgL) C (M \\ A, 0oM \\ 0A) is one of the following types:

(1) (T? x I, (T? x I)NdyM), where one of the boundary components T? x 91 is
a torus component of P.

(2) (S"x D?, (8! x D*)NdyM), which is a solid torus with annuli in the boundary.

(3) (I-bundle, d1-subbundle), which is an I-bundle over a surface whose Euler
characteristic is negative, and the I1-bundle over the boundary is contained in
AUP.

@) (L, LNaogM), where L has no essential annuli whose boundary is contained
in LNogM.

A neighborhood of a torus component of P is either of type 1 or of type 4. One
of the boundary components 72 x 91 of type 1 is a torus component of P, and
the intersection of the other boundary component and dyM is a union of essential
annuli in the torus. The intersection (S' x D?) N dyM in a component of type 2
is a union of essential annuli in 3(S' x D?). The union of components of type 3
is called the window. A component of type 4 is the acylindrical pared manifold
(L, L—099M). The union of the components of type 4 is called the guts and denoted
by Guts(M, P). A torus boundary component of the guts is a torus component
of P.

The definition of guts in [Agol 2010] is a bit different from ours. There, the guts
are defined to be the union of types 1, 2 and 4. The definition in [Agol et al. 2007]
is same as ours, and it is appropriate for our purpose.
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Let M be a finite volume orientable hyperbolic manifold. For an essential surface
XCM,(M\ X, P\ dX) is a pared manifold by Lemma 2.3. Therefore, we can
define Guts(X) = Guts(M \\ X, P \\ dX). Then the components of Guts(X) admit
hyperbolic structures with geodesic boundary by Theorem 2.2. Hence the volume
vol Guts(X) is defined. This volume is not greater than the volume of M.

Theorem 2.5 [Agol et al. 2007, Theorem 9.1]. Let M be a finite volume orientable
hyperbolic manifold, and X C M be an essential surface. Then

\%
vol M > vol Guts(X) > 78|X(a Guts(X))|.

Moreover, the refinement by Calegari, Freedman and Walker (in [Calegari et al.
2010, Theorem 5.5]) implies that M is obtained from ideal regular octahedra by
gluing along the faces when the equality holds.

The estimate of vol Guts(X) from below in Theorem 2.5 follows from the fol-
lowing theorem.

Theorem 2.6 [Miyamoto 1994, Theorem 5.2]. Let M be a hyperbolic manifold
with totally geodesic boundary. Then volM > Vg/2|x(dM)|. Moreover, M is

obtained from ideal regular octahedra by gluing along their faces when the equality
holds.

Lemma 2.7. Let M be a finite volume orientable hyperbolic 3-manifold, and X C M
be a nonempty essential surface. Then each component of Guts(X) has negative
Euler characteristic.

Proof. Since the Euler characteristic of every closed 3-manifold is 0, we have
x (Guts(X)) = % x (0 Guts(X)). Assume that there is a component L of Guts(X)
such that x (L) > 0. Since no component of d Guts(X) is a sphere, x (L) =0 and
dL consists of tori. Since M is atoroidal, dL C dM. This implies L = M by
connectedness of M. This contradicts the fact that X is not empty. (]

This lemma implies that y (3 Guts(X)) < —4 if Guts(X) is not connected.

We will use annular compressions to obtain a surface whose guts are not empty.
Definition 2.8. Let (X, 0X) C (M, 9 M) be an essential surface in a 3-manifold. A
compressing annulus is an embedding i : (S x I, $'x {0}, S'x{1}) = (M, X, dIM)
such that

« i, induces injective maps on 7y,

e i(S'xIHNX =i(S" x {0}), and

e i(S' x {0}) is not isotopic in X to 0X.
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i(St x I)

Figure 2. An annular compression.

An annular compression of (X, 0X) C (M, dM) is the surgery along a com-
pressing annulus i (S' x I). Let U be a regular neighborhood of i (S' x I) in M \\ X,
and put dgU = U N (X UIM) and 0;U = 0U — (X UdM). Then the surface
X' = (X —0oU)U a1 U is called the annular compression of X. If X is essential,
X' is also essential. We will say that Ao = dU N9dM is the annulus in the boundary
created by the annular compression (Figure 2). This annulus is not contained in the
window of M \\ X’.

Lemma 2.9 [Agol 2010, Lemma 3.3]. Let M be a finite volume orientable hyper-
bolic manifold. Let X C M be an essential surface. If X has a compressing annulus,
let X' be the annular compression of X. Then the annulus in the boundary created
by this annular compression is not contained in the window of M \\ X'.

The following lemma is used in the proof of [Agol 2010, Theorem 3.4]. Lemmas
2.9 and 2.10 imply that a torus or an annulus in the boundary is contained in the
boundary of the gut regions after we perform annular compressions as many times
as possible.

Lemma 2.10. Let M and X be as above. We assume that a T* x I component or
an S' x D* component intersects a component T of dM. Then we can perform an
annular compression for X toward T.

The following theorem is a result in [Culler and Shalen 1984, Theorem 3]. We
will use it to find an essential surface to start the proof of Theorem 4.3.

Theorem 2.11. Let M be a finite volume orientable hyperbolic manifold with n
cusps, and let oM =T, U ---UT,, where T; is a torus for 1 <i <n. Let k be an
integer such that 1 < k < n. Then there is an essential surface X C M such that
oXNT; #Tforl1 <i<kand o XN (T 1 U---UT,) =02.

3. Essential surfaces in 3-manifold with boundary

In this section we find an essential surface in a hyperbolic 3-manifold with geodesic
boundary. Using this we will estimate the volume of a hyperbolic 3-manifold
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with geodesic boundary with at least 4 cusps. Essential surfaces are found by
a homological argument for 3-manifolds, and it is not necessary to assume the
hyperbolic structure.

Lemma 3.1 [Hatcher 2007, Lemma 3.5]. Let M be a compact orientable 3-manifold.
Then the rank of the boundary homomorphism 0,: Hy(M, oM; Q) — H(dM; Q)
is half of the dimension of Hi(dM; Q).

Lemma 3.2. Let L be an orientable hyperbolic 3-manifold with geodesic boundary
S, with k annular cusps Ay, ..., Ay and with n —k torus cusps Tyy1, ..., T,, where
1 <k <3andn > 4. Assume that x (S) = —2. Then there is an essential surface
Y CLsuchthatYNS=@ and [0Y]#A0€ H\(0L; 7).

Proof. The union S’ = SU A U---U A, is a closed surface of genus 2. We note
that there are only two types of essential closed curves in §’; one separates S” and
the other does not. There are no pairs of disjoint separating curves in S’.

We can take k — 1 annuli of {Ay, ..., Ag} such that the complement of them
is connected. The image of d,: Ho(L,dL; Q) — H(dL; Q) is a subspace of
Hi(dL; Q) = @>"=H+4 of dimension n — k + 2, by Lemma 3.1. We consider
the subspace V of H;(dL; Q) spanned by all the elements represented by curves
inAy,...,Ar—1, Tgs1, ..., Ty. Since the dimension of V is 2(n — k) + (k — 1),
V intersects Im(d,) in a nontrivial subspace of H;(dL; @). Hence there exists a
nonzero element z in H,(L, 9 L; @) such that 9,z # 0 and z belongs to V. By taking
a multiple of z, there exists a nonzero element z’ in H,(L, dL; Z) such that 8,z #0
and 0,7’ is represented by a union of closed curves in Ay, ..., Ax—1, Txt1s .-+, In.
We can find an essential surface Y representing z’ such that

YCAU-- - UA Ul U---UT,. |

4. Estimate of volume

Now we are going to estimate the volume of a hyperbolic manifold with geodesic
boundary. Lemma 3.2 and Theorem 4.1 imply that the volume of an orientable
hyperbolic 3-manifold with 4 cusps and with geodesic boundary is not less than 2 V.

Theorem 4.1. Let L be an orientable hyperbolic 3-manifold with geodesic bound-
ary S. Suppose that there is an essential surface Y C L such that Y NS = @
and [0Y] # 0 € H{(OL;Z). Then there is an essential surface Y' such that
x (0 Guts(L\ Y')) < —4 and vol L > 2Vj.

If x(S) < —4, then vol L > 2Vg by Theorem 2.6. Hence we may assume that
x(8) = —2. Let §’ denote the surface which is the union of S and the annular cusps
of L. 9L consists of §” and the torus cusps of L.

We will find an essential surface Y’ such that x (9 Guts(L \\ Y’)) < —4. Then
x (@ Guts(DL \\ (DY' U S)) < —8, where DL is the double of L (the hyperbolic
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manifold obtained from two copies of L by gluing along the geodesic boundary §)
and DY’ is the union of two copies of Y’ in DL. Then Theorem 2.5 implies
vol DL > 4Vg, and so vol L > 2Vj.

We will find a gut component intersecting S. For this we need to know how a
window component intersects S.

Lemma 4.2. Let L, S and Y be as above. Assume that S intersects a component
(J, doJ) of the window of L\ Y. Then (J, doJ) is a product I -bundle and intersects
S only on one component of the d1-bundle.

Proof. Suppose that the base space of J is nonorientable. Since dyJ is connected,
doJ C S. We take a simple closed curve « in J such that « is projected to an
orientation-reversing loop in the base space of J. There is a simple closed curve
B in 8yJ such that [8] = [«]?> € 71 (DL) C Isom™ (H3). If B is homotopic to the
boundary of dyJ, the base space of J is a Mobius band. It contradicts the definition
of the window. Hence [8] € 71 (S) C Isom™ (H?) is hyperbolic element. The simple
closed curve 8 is homotopic to a simple closed geodesic 8’ in S [Ratcliffe 2006,
Theorem 9.6.5]. But the fact that [8'] = [«]? contradicts the fact that an element
represented by a simple closed geodesic in a hyperbolic manifold has no roots
[Ratcliffe 2006, Theorem 9.6.2]. Therefore no twisted /-bundle intersects S.
Suppose that the base space of J is orientable and both components Q¢ and Q;
of dgJ are contained in S. Since x(Qg) = x(Q1) < 0, there are (not necessarily
simple) closed curves y; C Q; (i = 0, 1) such that y; is not homotopic to the
boundary of Q; and y and y; are homotopic in L. Let ;/ be the closed geodesic in
Q; homotopic to y;. Since L is totally geodesic, the two closed geodesics y; and
¥, are homotopic in L. It contradicts the uniqueness of the closed geodesic in a
homotopy class. Therefore a product /-bundle intersects S on at most one side of
the d/-bundle. U

Proof of Theorem 4.1. Let Yy be an essential surface in L such that YoNS = o
and [0Yg] #0 € H (0L; Z). Moreover let |x (Yp)| be minimal among the surfaces
satisfying these conditions. Since L has no essential sphere, disk, torus or annulus,
X (Yo) < 0. Let p: L\ Yo — L be the natural projection.

(1) First we consider the case where S intersects a component (J, dpJ) of the window
of L\\ Yp. Then x (J) is equal to —1 or —2. We will show that x (J) = —1. Assume
that x(J) = —2. SN p(J) is a 2-punctured torus or a 4-punctured sphere. (If
it is a closed surface, Yo N p(J) is a component of Yy which is parallel to S’. It
contradicts that Y is essential.) Let Yé be the surface which is the union of annuli
(Figure 3) and Yy — (Yo N p(J)). If there is an annulus in L — Yy whose boundary is
two components of the frontier of Yy — (Yo N p(J)), we glue Yy — (Yo N p(J)) and
this annulus (the upper of Figure 3). Since Yy N p(J) is connected, the orientation
matches. Otherwise, there is an annular cusp which is homotopic to the frontier of
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5 YO’
Yo
! i
S 7 S

’ —~
S annular cusp S

Figure 3. Constructions in the case where S intersects a component
of the window whose Euler characteristic is —2.

Yo— (YoN p(J)). Then we can glue Yy — (Yo N p(J)) and the two annuli, where
one of the boundary components of each annulus is contained in this annular cusp
(the lower of Figure 3). Then [Y], 0Y(] = [Yo, Y] € H2(L, 0L; Z). We obtain an
essential surface from Y by compressing if necessary. Then |x (Y| < |x (Yo)l,
contradicting the choice of Y. Therefore y (J) = —1.

We will find an essential surface Y; such that S intersects only one component
of the window of L \\ Y;. If S intersects only one component of the window of
L \\ Yy already, put Y| = Yy. Suppose that S intersects two components (J, dgJ)
and (J', 3pJ") of the window of L \\ Yy. Let Y] be the surface which is the union
of Yo — (Yo N p(J)) and a surface in p(J’) (Figure 4). Then

(Y}, 0Y{] = [Yo, 9ol € Hy(L, IL; Z).

Note that since the orientation may not match, we cannot construct a surface as in
Figure 3. If Y} is not essential, we obtain an essential surface simpler than Y, by
compressing Y. Since this Y} is essential.

Suppose that S intersects two components of the window of L \\ Y| again. Then
one of these two components is contained in p(J’). We can perform the above
construction again and remove a part of ¥ which is contained in the boundary of
the window. Since no /-bundle can intersect S essentially along both components
of the boundary by Lemma 4.2, the part of the obtained surface in p(J’) is not
contained in the boundary of the component of the window which intersects S and
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Yy
Y, >
S’ J J’

S/

s, ...
S annular cusp S
Figure 4. Constructions in the case where S intersects 2 compo-

nents of the window whose Euler characteristics are —1.

lies on the same side as p(J). Hence the above construction can be performed only
finitely many times.

Let Y; be the essential surface obtained by performing the above construction as
many times as possible. The Euler characteristic of the intersection of S and the
window of L \\ Y| equals —1. Therefore the Euler characteristic of the intersection
of § and Guts(L \\ Y7) is equal to —1. In particular, Guts(L \\ Y1) # @.

We will find an essential surface Y, such that x (0 Guts(L \\ Y»)) < —4. If
x (@ Guts(L \\ 1)) < —4, put Y, = Y. Suppose that x (d Guts(L \\ ¥1)) = —2.
Since the Euler characteristic of d Guts(L \\ Y;) — §’ is equal to —1, it is either a
1-punctured torus or a 3-punctured sphere.

Suppose that d Guts(L \\ Y1) — S’ is a 1-punctured torus. Then d Guts(L\\ Y;)— S’
can contain a pared annulus, and Y7 N ad Guts(L \\ Y1) is a 1-punctured torus or a
3-punctured sphere. If ¥Y; N3 Guts(L \\ Y1) is a I-punctured torus, let Y| be the
surface which is the union of ¥; — (Y1 N ad Guts(L \\ ¥7)) and a surface in p(J')
(Figure 5). If Y, N9 Guts(L \\ ¥;) is a 3-punctured sphere, we obtain the surface Y,
by modifying Y; around the pared annulus in 3 Guts(L \\ Y1) — S’ (Figure 6). Here
Y, N3 Guts(L \\ ¥;) is a 1-punctured torus. Thus we obtain an essential surface Y 1
as the union of ¥; — (fl N Guts(L \\ Y1)) and a surface in p(J') (Figure 5).

Suppose that d Guts(L \\ Y;) — S’ is a 3-punctured sphere. d Guts(L \\ Y7) — S’
does not contain a pared annulus. Let Y| be the surface which is the union of
Y, — (Y1 N3 Guts(L \\ Y7)) and a surface in p(J').
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Figure 5. Constructions in the case where d Guts(L \\ Y;) = —2.

D

Yy NOGuts(L \\Y7) Y1 N AGuts(L \\Y1)

Figure 6. A construction around a pared annulus in the boundary
of Guts(L \\ Y1) — S'.

We have obtained a surface Y| in these ways. Then, in general, we have
[Y{,0Y{1#[Y1,0Y1] € Ho(L,dL; Z), but [0Y{]1=[0Y,]1# 0 € H(dL; Z). Since
Ix (YD = |x(Yp)l, Y; is essential.

Since Y1 N3 Guts(L \\ Y1) cannot be contained in the window of L\\ Y7, it follows
that SN 3 Guts(L \\ Y}) is not contained in the window of L \\ Y{. Hence we can
consider that Guts(L \\ Y{) contains SN 3 Guts(L \\ Y1). Since Y] is essential, the
added surface in the window is not contained in Y| N9 Guts(L \\ Y{). Hence the
above construction can be performed only finitely many times.
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Let Y, be the essential surface obtained by performing the above construction
as many times as possible. Then x (3 Guts(L \\ Y2)) is no longer equal to —2, and
x (0 Guts(L \\ Y2)) < —4.

(i1) Suppose that S intersects no component of the window of L \\ ¥Yy. Then
x (Guts(L\\ Yg)NS) = —2. Assume that x (d Guts(L\\ Yp)) = —2. 9 Guts(L \\ Yp) is
a closed surface which is the union of a surface in S and annuli. Since L is atoroidal,
d Guts(L \\ Yp) contains the closed surface S’. Hence d Guts(L \\ Yy) consists of S’
and some torus cusps of L. The connectivity of L implies that L = Guts(L \\ Yp).
It contradicts that Yy is nonempty. Therefore x (d Guts(L \\ Yp)) < —4. [l

We prove the essential part of Theorem 1.2.

Theorem 4.3. Let M be an orientable hyperbolic manifold with 4 cusps. Then
vol M > 2Vg. Moreover, if vol M = 2Vg, M is obtained from two ideal regular
octahedra by gluing along the faces.

Proof. 1t is sufficient to find an essential surface X C M such that x (9 Guts(X)) <
—4. Then Theorem 4.3 follows from Theorem 2.5.

Let T, ..., T4 be the cusps of M. We take an essential surface X¢ such that
XoNT) #2and XoNT; = (2 <i <4) by Theorem 2.11. We perform annular
compressions for Xy as many times as possible to obtain an essential surface X.
When annular compression is performed, the number of boundary components
of the surface increases and its Euler characteristic does not change. Since the
Euler characteristic of each component of the obtained essential surface is negative,
annular compressions can be performed only finitely many times.

We will show that Guts(X) intersects 73, ..., T4. Let k be the number of cusps
intersecting X (1 < k <4). Let T, ..., T} be the cusps intersecting X;. Let
Ay, ..., Ax be the annuli in 75 \\ X7, ..., Tx \\ 0X; created by the last annular
compressions to 7, ..., Tx. Since there are no compressing annuli any more,
Lemma 2.10 implies that Ay, ..., Ay are not contained in a solid torus component
of the JSJ decomposition of M \\ X and Tj1, ..., T4 are not contained in a
T? x I component of it. Since compressing annuli to different cusps can be taken
disjointly, we may change the order of annular compressions to different cusps. By
Lemma 2.9, A, ..., Ay are not contained in the window of M \\ X ;. Therefore
Ao, oo, Ay Tty - .., Ty C 0 Guts(X ).

If Guts(X) is not connected, then x (0 Guts(X;)) < —4 as desired. Suppose
that Guts(X) is connected. Then Ay, ..., Ag, Tk+1, ..., T4 are contained in one
component N of M \\ X;. We will find an essential surface X, such that d Guts(X»)
contains at least 4 pared components.

(1) Suppose that (77 \dX ) NN # &. If N =Guts(X), let A| be an annulus which
is a component of (77 \\ X ) N N. Otherwise let A| be an separating annulus of
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the JSJ decomposition intersecting Guts(X1). In either case, A is a pared annulus
of Guts(X) different from A,, ..., Ax. Then it is sufficient to put X, = X.

(i) Suppose that (T1\0X|)NN =@. Let X| = XN p(N), where p: M\ X| — M
is the natural projection. Then X/ is an essential surface in M and 71 N X| = @.
X/ is the union of the components of X intersecting N. If we cannot perform an
annular compression for X| to T, Guts(X)) contains a neighborhood of 7; which
is in the complement of N. Since Guts(X) is not connected, x (3 Guts(X)) < —4.
Then it is sufficient to put X, = X7.

If we can perform an annular compression for X to 7;, we obtain X, by
performing annular compressions to 77 as many times as possible. Let A; be
the innermost annulus in 7. Since X is obtained by performing annular com-
pressions as many times as possible, there is no compressing annulus for X/ to
Ay, ooy Ak, Ti41, ..., Ta in p(N). Hence there is no compressing annulus for
Xoto Ay, ..., Ak, Tit1, - .., Ta in p(N). Since the surface which is obtained by
filling X| with A, ..., A consists of components of a surface in the process
of the annular compression from Xy to X, it is essential. This implies that
Ay, ..., Ay are not contained in the window of M \\ X, by Lemma 2.9. Therefore
A, ooy Ak, Tty - -, Ty C Guts(X 7).

Finally, we will find an essential surface X such that x (d Guts(X)) < —4. If
k=4, the 4 annuli Ay, ..., As are disjoint and not homotopic to each other in the
nontorus components of d Guts(X;). This implies that x (0 Guts(X;)) < —4. Then
it is sufficient to put X = X».

If 1 <k <3, vol Guts(X;) > 2Vg by Theorem 4.1. Therefore vol M > 2Vg by
Theorem 2.5. But we need to find X in order to prove that M is obtained from 2
octahedra when the equality holds. Lemma 3.2 and Theorem 4.1 imply that there is
an essential surface Y in Guts(X,) such that x (0 Guts(Guts(X3) \\ Y)) < —4. Then
Y intersects some of Ay, ..., Ak, Tg+1, ..., T4, Wwhere Ay, ..., Ag, Tra1, ..., Ty
are contained in M. If A, is contained in d M or does not intersect Y, X3UY is
properly embedded in M. Since Guts(X, UY) = Guts(Guts(X») \\ Y), we obtain
x (0 Guts(X,UY)) < —4. Then itis sufficient to let X = X,UY. If A| is contained in
the interior of M and intersects Y, X3 UY is not properly embedded in M. Suppose
that A; NY is the union of / simple closed curves. Let X be the union of 2 surfaces
parallel to Y, X, Nd Guts(X,) and / 4+ 1 times of X, — d Guts(X») (Figure 7). Since
Guts(X) is homeomorphic to Guts(Guts(X>) \\ ¥), x (9 Guts(X)) < —4. O

5. Realization of hyperbolic manifold

In this section we will prove that an orientable hyperbolic 3-manifold obtained
from 2 ideal regular octahedra by gluing along the faces is homeomorphic to the
complement of the 83' link. This completes the proof of Theorem 1.2.
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Figure 7. A construction of an essential surface the boundary of
whose guts is no more than —4.

Thurston [1980, Chapter 6, Example 6.8.6] calculated the volume of the com-
plement of the 8‘2l link to be 2Vg. SnapPy [Culler and Dunfield unskip] has the list
of the orientable hyperbolic 3-manifolds obtained from 8 ideal regular tetrahedra
by gluing along the faces. These imply the uniqueness of the minimal volume
orientable hyperbolic 3-manifold with 4 cusps, but we prove it here by an elementary
argument examining the possible ways of gluing along the faces of 2 octahedra.

The 12 vertices of the 2 octahedra correspond to the 4 cusps of the hyperbolic
manifold. We look at the number of vertices corresponding to each cusp. Since
the edge angles of an ideal regular octahedron are right angles, 4 edges of the 2
octahedra should be glued together.

Claim 5.1. If there is a cusp consisting of one vertex x, the faces around x are
glued as in Figure 8(a). If there is a cusp consisting of 2 vertices a and b, the faces
around a and b are glued as in Figure 8(b).

Proof. 1f there is a cusp consisting of one vertex x, the 4 edges around x are glued
together, and each face around x is glued with the opposite face.

Suppose there is a cusp consisting of 2 vertices a and b. Assume that a and b
are contained in one octahedron. If @ and b are adjacent, no edges can be glued

(b)

Figure 8. Face gluings for a one-vertex cusp (a) and a two-vertex
cusp (b). In each case, edges with the same number are to be
identified, and likewise with vertices. Unprimed faces are to be
identified with their primed counterparts.
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A/

a & A/

Figure 9. An impossible example in the case where two vertices
form a cusp. Face A is glued to A" and B to B'.

with the edge between a and b. If b is opposite to a, we can glue no pairs of faces
which are contained in different octahedra. This contradicts the connectivity. Hence
a and b are contained in different octahedra.

We consider how the 8 edges around a are b are glued. Since a and b are glued,
the 4 edges around a cannot be glued together. If 3 edges around a and one edge
around b are glued together, 2 adjacent faces around a are glued (the left of Figure 9).
Then the edge between the 2 faces can be glued with no edges. Hence 2 edges
around a and 2 edges around b are glued together. Assume that adjacent edges
around a are glued. Let x and y be the vertices opposite to a and b, respectively.
If x and y form 2 cusps with themselves, there are 2 edges glued with no other
edges. Since there are 4 cusps, there is a cusp consisting of x and y. There are 2
edges glued with no other edges even in this case (the right of Figure 9). Therefore
opposite edges around a are glued and the way of gluing is determined. (]

Claim 5.2. There is no cusp consisting of 3 vertices.

Proof. Assume that there is a cusp consisting of 3 vertices a, b and c. If a, b and
c are vertices of one octahedron, 2 positions are possible (the left of Figure 10).
If a, b and c are the vertices of one face, this face cannot be glued with another
face. Otherwise, at least one of a, b and c¢ is contained in a face of the octahedron
containing a, b and c. This implies that no pair of faces of different octahedra
can be glued. Hence a, b and c are not contained in one octahedron. We assume
that b and ¢ are contained in one octahedron without loss of generality. Then 2
positions are possible (the right of Figure 10). If b and ¢ are adjacent, no edges can
be glued with the edge between b and c. Hence c is opposite to b. Let x be the
vertex opposite to a. Since only the 4 faces around x do not contain a, b or c, the 4
faces cannot be glued with any faces of the other octahedron.

Assume that x does not form a cusp with itself. Suppose that adjacent faces
around x are glued. Then the 5 vertices except a of the octahedron containing a are
glued together. There are 2 vertices y and z which form 2 cusps with themselves
on the octahedron containing b and c. The 4 vertices around y are glued together
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C

Figure 10. Positions of three vertices.

These points form two cusps with themselves.

Figure 11. Five vertices of an octahedron cannot be glued together.

by Claim 5.1 (Figure 11). This contradicts that b is glued only with a and c. Hence
opposite faces around x are glued.

Suppose that opposite faces A and B around x are glued with a twist, that is, the
2 vertices corresponding with x in A and B are not glued. Then 2 opposite vertices
on the octahedron containing a are glued with x. Since the 5 vertices except a of
the octahedron containing a cannot be glued together, the other faces C and D
around x are glued with a twist. The 4 faces around a are glued with faces of the
other octahedron because of the correspondence of the vertices and the fact that
adjacent faces around a cannot be glued. Hence there is a vertex which forms a
cusp with itself on the octahedron containing b and ¢ (Figure 12). This contradicts
that b is glued only with a and c.

Hence x forms a cusp with itself. Since 4 edges are glued together, the faces
around a are glued with faces of the other octahedron. At least 3 vertices of the
octahedron containing b and c¢ are glued with the 4 vertices except a and x. Since
we must obtain 4 cusps, there is a vertex that forms a cusp with itself. This is a
contradiction. (]
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This point forms a cusp with itself.

X!

Figure 12. Opposite faces cannot be glued with a twist.

Figure 13. First gluing of the octahedra.

Claim 5.2 implies that there is a cusp consisting of one or 2 vertices. Suppose
that there is a cusp consisting of one vertex x. The 4 vertices around x are glued
together. The 4 faces A, B, C and D around the vertex a opposite to x are glued
with faces of the other octahedron. Vertex a is glued with only one vertex b because
of Claim 5.2 and the fact that 7 vertices are glued. Since the 8 vertices around a
and b are glued together, the vertex y opposite to b forms a cusp with itself. The
numbers of the vertices corresponding to the cusps are 1, 1,2 and 8. By Claim 5.1
the way of gluing is determined as in Figure 13.

Suppose that there is no cusp consisting of one vertex. Then there is a cusp
consisting of 2 vertices @ and b. A, A’, B, B’, C, C’, D and D’ around a and b are
glued as Figure 8. Since no cusp consists of one vertex, the 2 vertices x and y
opposite to a and b, respectively, are glued together. The numbers of the vertices
corresponding to the cusps are 2, 2, 4 and 4. The face E adjacent to A is glued with
the face E’ adjacent to B’ because of the correspondence of the vertices and edges.
The way of gluing is determined as in Figure 14.

Figure 14. Second gluing of the octahedra.
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Both gluings of the octahedra give homeomorphic spaces by Figure 15 and they
are the 8‘2l link complements by Figure 16.

Glue A, B and A', B'.

!
Thick lines correspond to cusps. D ¢

F

o G il 1

T |
P | e
%
G/

Tt Separate the front and

Fy F, B} E| back and glue C, D and
Let Ey, Ey, Fy and F; be the faces C', D' by rotating by 180°.
obtained by dividing F and F.

’ J, I
H Tk
El (/) d
Rotate by 90° around . P
the central thick line. : / " G
IS P LN
The ways of gluing are A_ﬁ
identical though the ways - ¥ }j"
of division are different. Fy F| o Ep

Let I,I',.J and J’ be the new sections.

E led

Figure 15. The gluings from Figures 13 and 14 (replicated in
diagrams (i) and (ii) at the top) lead to homeomorphic spaces.
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Separate the upper
and lower and glue
¢! E,G and E' G

1

Rotate the right half by 180%™ o

§

LT

Glue C;, D; and CY, D..

, Rotate thc lmxm
J! I I J’ half by 1

Let I,1I',.J and J’ be the new sections.

Glue I, J and I, J'.

>

—®-5
8-

Figure 16. The space obtained in Figure 15 is the complement of
the 83 link.
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ON THE WITTEN RIGIDITY THEOREM
FOR STRING® MANIFOLDS

JIANQING YU AND Bo LIu

We establish family rigidity and vanishing theorems on the equivariant K-
theory level for the Witten type operators on string® manifolds introduced
by Chen, Han, and Zhang.

1. Introduction

Witten [1988] derived a series of elliptic operators on the free loop space £M of a
spin manifold M. In particular, the index of the formal signature operator on the
loop space turns out to be exactly the elliptic genus constructed by Landweber and
Stong [1988] and Ochanine [1987] in a topological way. Motivated by physics,
Witten proposed that these elliptic operators should be rigid with respect to the
circle action.

This claim of Witten was first proved by Taubes and Bott [Taubes 1989; Bott and
Taubes 1989]. See also [Hirzebruch 1988; Krichever 1990] for other interesting
cases. Using the modular invariance property, Kefeng Liu [1995; 1996] presented a
simple and unified proof of the above result as well as various further generalizations.
In particular, Liu established several new vanishing theorems.

Chen, Han, and Zhang [Chen et al. 2011] introduced a topological condition
which they called the string® condition for even-dimensional spin® manifolds. Under
this string® condition, they constructed a Witten type genus which is the index of
a Witten type operator, a linear combination of twisted spin® Dirac operators.
Furthermore, by applying Liu’s method [1995; 1996], Chen, Han, and Zhang
established the rigidity and vanishing theorems for this Witten type operator under
the relevant anomaly cancellation condition; see [Chen et al. 2011, Theorem 3.2].

In many situations in geometry, it is rather natural and necessary to generalize
the rigidity and vanishing theorems to the family case. On the equivariant Chern
character level, Liu and Ma [2000; 2002] established several family rigidity and
vanishing theorems. In [Liu et al. 2000; Liu et al. 2003], inspired by [Taubes 1989],
Liu, Ma, and Zhang established the corresponding family rigidity and vanishing
theorems on the equivariant K -theory level. As explained in [Liu et al. 2000; Liu

MSC2010: primary 58J26; secondary 58J20.
Keywords: elliptic genus, string® manifold, K -theory.
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et al. 2003], taking the Chern character might kill some torsion elements involved in
the index bundle. Therefore, the rigidity and vanishing properties on the K-theory
level are more subtle than those on the Chern character level.

The purpose of this paper is to establish the family rigidity and vanishing theorems
on the equivariant K -theory level for the Witten type operators introduced in [Chen
et al. 2011]. In fact, our main results in Theorem 2.2 may be regarded as an
analogue of [Liu et al. 2000, Theorem 2.1; Liu et al. 2003, Theorems 2.1 and 2.2].
In particular, if the base manifold is a point, from our family rigidity theorem, one
deduces [Chen et al. 2011, Theorem 3.2(i)]. Both the statement and the proof of
Theorem 2.2 are inspired by those of [Liu et al. 2000, Theorem 2.1; Liu et al. 2003,
Theorems 2.1 and 2.2], which essentially depend on the techniques developed by
Taubes [1989] and Bismut and Lebeau [1991].

This paper is organized as follows. In Section 2, we state (in Theorem 2.2) and
prove our main results, providing rigidity and vanishing for the family Witten type
operators introduced in [Chen et al. 2011]. Section 3 is devoted to the proofs of
two intermediate results, Theorems 2.8 and 2.9, which are used in the proof of
Theorem 2.2.

2. Rigidity and vanishing theorems in K -theory

In this section, we establish the main results of this paper, the rigidity and vanishing
theorems on the equivariant K-theory level for a family of spin® manifolds. Such
theorems hold under some anomaly cancellation assumption which is inspired by
the string® condition from [Chen et al. 2011]. For the particular case when the base
manifold is a point, our results imply Theorem 3.2(i) of that reference.

This section is organized as follows. In Section 2A, we reformulate a K -theory
version of the equivariant family index theorem which is proved in [Liu et al. 2003,
Theorem 1.2; Liu et al. 2000, Theorem 1.1]. In Section 2B, we state our main
results, the rigidity and vanishing theorems on the equivariant K -theory level for a
family of spin® manifolds. In Section 2C, we state two intermediate results on the
relations between the family indices on the fixed point set, which are used to prove
our main results stated in Section 2A. In Section 2D, we prove the family rigidity
and vanishing theorems.

2A. A K-theory version of the equivariant family index theorem. Let M, B be
two compact manifolds, and = : M — B a smooth fibration with compact fiber
X such that dim X = 2/. Let TX denote the relative tangent bundle carrying
a Riemannian metric g7%X. We assume that 7X is oriented. Let (W, ") be a
complex Hermitian vector bundle over M.

Let (V, gV) and (V/, gV/) be oriented real Euclidean vector bundles over M,
of respective dimensions 2p and 2p’. Let (L, h*) be a complex Hermitian line
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bundle over M with the property that the vector bundle U = TX @ V @ V' satisfies
w2 (U) =c1(L) mod 2, where w; denotes the second Stiefel-Whitney class, and
c1 denotes the first Chern class. Then the vector bundle U has a spin®-structure.
Let S(U, L) be the fundamental complex spinor bundle for (U, L); see [Lawson
and Michelsohn 1989, Appendix D].

Assume that there is a fiberwise S'-action on M which lifts to V, V/, L, and W,
and assume the metrics g7%, gV, ¢"', h%, and AW are S'-invariant. Also assume
that the S'-actions on 7X, V, V’, L lift to S(U, L).

Let VIX be the Levi-Civita connection on (TX, gTX ) along the fiber X. Let
VvV and VY’ be §'-invariant Euclidean connections on (V,g") and (V/, gv/), re-
spectively. Let VX and V" be S'-invariant Hermitian connections on (L, h*) and
(W, "), respectively.

The Clifford algebra bundle C(7'X) is the bundle of Clifford algebras over X
whose fiber at x € X is the Clifford algebra C(7,X); see [Lawson and Michel-
sohn 1989]. Let C(V) and C (V') be the Clifford algebra bundles of (V, g") and
V', g").

Let {ei}?l: yand {f j}ii | be oriented orthonormal bases for (TX, g™)and (V, g"),
respectively. We denote by c(-) the Clifford action of C(TX), C(V), and C(V’) on
S(U, L). Let 7 be the involution of S(U, L) given by

(2-1) T =W=1)""Pc(er) - clea)e(fi) - c(fap)-

In the rest of the paper, we say that 7 is the involution determined by 7X @& V.
We decompose S(U, L) = S (U, L) & S_(U, L) corresponding to T such that
tls, .0y = 1. Let VSW:D) be the Hermitian connection on S(U, L) induced by
vIX vV, VV/, and VZ; see [Lawson and Michelsohn 1989, Appendix D]. Then
VSW.L) preserves the Z,-grading of S(U, L) induced by (2-1). Let VS(W:L@W pe
the Hermitian connection on S(U, L) ® W obtained from the tensor product of
VSW.L) and VY. Let DX ® W be the family twisted spin‘-Dirac operator on the
fiber X defined by
21
(2-2) DX@W =) c(e)Vy LoV,

i=1

By [Liu and Ma 2000, Proposition 1.1], the index bundle Ind, (D* ® W) over B is
well-defined in the equivariant K-group Kgi (B). Using the same notations as in
[Liu et al. 2003, (1.4)—(1.7)], we write, as an identification of virtual S!-bundles,
(2-3) Ind, (D* @ W) = @ Ind. (DX @ W, n) ® [n],

nez

where by [n] (n € Z) we mean the one-dimensional complex vector space on which
S! acts as multiplication by g” for a generator g € S'.
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Let F = {F,} be the fixed point set of the circle action on M. Then = : F, — B
(respectively  : F — B) is a smooth fibration with fiber Y, (respectively Y). Let
7 : N — F denote the normal bundle to F in M. Then N = TX/TY. We identify
N as the orthogonal complement of 7Y in TX|r. Then TX|r admits the following
S 1—equivariant decomposition (see [Liu et al. 2003, (1.8)]):

(2-4) TX|rp=@P N, ®TY,
v#0

where N, is a complex vector bundle such that g € S! acts on it by g with v € Z\{0}.
Clearly, N =D, 20 Nv. We regard N as a complex vector bundle and write Ng for
the underlying real vector bundle of N. For v # 0, let N, g denote the underlying
real vector bundle of N,.

Similarly, let (see [Liu et al. 2003, (1.9) and (1.46)])

(2-5) Vir=@®V,aVE, Vip=@RV.eVE Wir=@Ww,
v#£0 v#0 v

be the S'-equivariant decompositions of the restrictions of V, V', and W over F,

respectively, where V,,, V,, and W, (v € Z) are complex vector bundles over F on

which g € ! acts by gV, and VOR and V(;R are the real subbundles of V and V’,

respectively, such that S! acts as identity. For v # 0, let V, g and VJ’R denote the

underlying real vector bundles of V,, and V,. Write 2py = dim VOR and 2lp =dimY.
Let us write (compare with [Liu et al. 2003, (1.47)])

—1
(2-6) Lr=18(Q@detN,®QdetV, @ @detV;) .
v7#0 v#£0 v#0 0

Then TY & VOR &) V(;R has a spin‘-structure. Let S(TY @ VOR @ V(;R, Lr) be the
fundamental spinor bundle for (TY & VOR ®V/®, Lr). Let R be a Hermitian complex
vector bundle equipped with a Hermitian connection over F. We denote by DY ® R
the family (twisted) spin® Dirac operator on S(T'Y & VOR ® V™R Lr)® R defined
as in (2-2) and by DY« @ R its restriction to Y.

Recall that N, g and V), g are canonically oriented by their complex structures.
The decompositions (2-4), (2-5) induce the orientations of 7Y and VOR respectively.
Let {ei}l.zlz"l, {f J-}?i !, be the corresponding oriented orthonormal basis of (T'Y, g™
and (VOR, gVOR). The involution of S(T'Y & VOR ® V/®, L) is canonically associated
to that of S(U, L), which we still denote by 7, which is given by

(2-7) T =(=1)"FPoc(er) - cleay)c(f1) - - - c(fapo)-

Let S(TYQVE® VR L) =S (TYSVEOVE, L) @S- TY® VIS VR, L)
be the Z,-grading of S(TY & VOR &) V(;R, L) induced by 7.
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Let C(Ngr) and C(V, r) be the Clifford algebra bundle of

(Ng, 8™ |ng) and  Vyg, 2"y, ),

respectively. By [Liu et al. 2003, (1.10)], A(N*) is a C(Ng)-Clifford module with
the involution 7| pevenjodd () = 1. Similarly to [Liu et al. 2003, (1.10)], we can
define the Clifford action of C(V, r) on A(V,*). Then A(V,*)isaC (Vy.r)-Clifford
module with the involution 7’| Aevenjodd (7x) = EL.

By restricting to F, one has the isomorphism of Z,-graded C(7X)-Clifford
modules over F as follows (compare with [Liu et al. 2003, (1.49)]):

2-8) (S(U. L), 1),

~ (STYSVEBVE Lp). 1) 8 (AN, ) B R AV, . 1)) R(AV, id),
v#0 v#£0
where id denotes the trivial involution and ® denotes the Z,-graded tensor product
(see [Lawson and Michelsohn 1989, p. 11]). Furthermore, the isomorphism (2-8)
gives the identifications of the canonical connections on the bundles (compare
with [Liu et al. 2003, (1.13)]).
Let S! acton L|p by sending g € St to g’f (I € Z) on F. Then . is locally
constant on F. Following [Liu et al. 2003, (1.50)], we define the following elements
in K (F)[lq"]:

(2-9)  R(g) =gl amNo=Tvdim Vo= T, vdimVitlo) @) (Sym,, (N,) @ det N,)

v>0

@ Sym, (N8R A (V)® ® Ay (V)@(Lq' We)

v<0 v#£0 v#£0
=2 Ruq"
and '
(2-10) R'(q) =q"/* >, ldim Ny=Y", vdim V, =Y, v dim V) +,) ® Sym,. (N,)
v>0

® @ (Sym,. (Ny) @ det Ny) ® @ A_gv (V)
v<0 v#0

®Q Ay (V)®(Zq W)=;R2q”

v#0

As explained in [Liu et al. 2003, p. 139], since TX ®V & V' ® L is spin, one
gets

(2-11) > vdimN,+ Y vdimV,+ Y vdimV,+L =0 mod 2.
v v v

Therefore, R(q), R'(g) € K(F)[q].
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The following theorem was essentially proved in [Liu et al. 2003, Theorem 1.2].

Theorem 2.1. For n € Z, the following identity holds in K (B):

(2-12) Ind, (DX ® W, n) = Y (=) Zo= 5 Ind (DY © R,)
o

=3 (~)ZeodimNognd, (DY @ R}).
o

2B. Family rigidity and vanishing theorems. Let w : M — B be a fibration of
compact manifolds with compact fiber X and dim X = 2/. We assume that S’
acts fiberwise on M and TX has an S'-invariant spin¢ structure. Let Kx be the
S'-equivariant complex line bundle over M which is induced by the S'-invariant
spin® structure of 7X. Let S(TX, Kx) be the complex spinor bundle of (TX, Kx);
see [Lawson and Michelsohn 1989, Appendix D].

Let V be an even-dimensional real vector bundle over M. We assume that V has
an S'-invariant spin structure. Let S(V) = ST(V)@® S~ (V) be the spinor bundle of
V. Let W be an S'-equivariant complex vector bundle over M. Let Ky = det(W)
be the determinant line bundle of W.

We define the following elements in K (M)[[¢'/?]):

Ri(V)=(ST(M)+5"(V)® <§> Agn(V),

n=1

@13) Ra(V) = (SH(V)=S"(V) @ @ A_pn(V),

n=1

R3(V)=@Q A_qn—l/2(V), Ri(V)=@Q Aqn—l/Z(V),
n=1 n=1

01 (W) = % Aq”(W) (24 élAqn(W) ® % A_qn—l/Z(W)

n=0 n=1

oo oo oo
®§1A,Qn_./z(W) ®gAq,,_l/z(W) ®gAqn—1/z(W).

For N € Z, N > 1, let y = ¢*™/N ¢ C. Let Gy be the multiplicative group
generated by y. Following [Witten 1988], as in [Liu et al. 2000, Section 2.1], we
consider the fiberwise action G, on W and W by sending y € G, to y on W and
y~!lon W. Then G, acts naturally on Q1 (W).

Let H ;‘1 (M,7)=H*(M xq ES 1. 7Z) denote the S 1—equivariant cohomology
group of M, where ES' is the universal S'-principal bundle over the classifying
space BS! of S'. So H;‘l (M, Z) is a module over H*(BS!, Z) induced by the
projection 7 : M x g ES' — BS!'. Let pi(-)g1 denote the first S'-equivariant
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Pontryagin class and w;(-)gi the second S'-equivariant Stiefel-Whitney class. As
V x ¢ ES' is spin over M x g1 ES', one knows that %pl(V}Sl is well-defined in
H ;1 (M, Z); see [Taubes 1989, pp. 456-457]. Recall that

(2-14) H*(BS',7) = Z[[u]]

with u a generator of degree 2.

In the following, we denote by DX ® R the family twisted spin® Dirac operator
acting fiberwise on S(TX, Kx) ® R. Recall that if Ind(DX ® R, n) vanishes for
n # 0, we say that DX ® R is rigid on the equivariant K-theory level for the
S'-action.

Now we can state the main results of this paper, which can be thought of as
analogous to [Liu et al. 2000, Theorem 2.1].

Theorem 2.2. Assume wy(W)g1 = wa(TX)g1, 3p1(V +3W —TX) g = e - *u>
(ee”Z)in H;l M, 7), and c;(W) =0 mod N. Fori =1,2,3,4, consider the
family of Gy x S Lequivariant twisted spin® Dirac operators

o
(2-15) D¥® (Kyw ® Kx")'? ® (R) Sym,. (TX) ® Ri(V) ® Q1(W).
n=1
(1) If e =0, these operators are rigid on the equivariant K -theory level for the
Sl-action.

(i) If e < O, the index bundles of these operators are zero in K¢ ,51(B). In
particular, these index bundles are zero in K, (B).

Remark 2.3. As explained in [Liu et al. 2000, Remark 2.1], wo (W) g1 = wa (T X) g1
means that %pl (BW —TX)gq is well defined and that c; (Ky ® K;l)sl =0 mod 2.
By [Hattori and Yoshida 1976, Corollary 1.2], the § L_action on M can be lifted to
(Kw ® K")'/? and is compatible with the S'-action on Ky ® K.

Take N =1, that is, we forget the G y-action on W and remove the corresponding
assumption ¢; (W) =0 mod N. Furthermore, take W = Kx and V = 0. Then
an interesting consequence of Theorem 2.2 is the following family rigidity and
vanishing property, which may be thought of as an extension of [Liu et al. 2003,
Theorem 2.3] to the spin® case. When the base manifold is a point, it turns out to
be exactly [Chen et al. 2011, Theorem 3.2(i)].

Corollary 2.4. Assume %pl BKx —TX)g =e-7*u* (e €Z) in H;‘l (M, 7). Con-
sider the family of S'-equivariant twisted spin® Dirac operators

(2-16) D* @ (X) Sym,. (TX) ® Q1(Kx).

n=1
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(1) If e =0, these operators are rigid on the equivariant K -theory level for the
S-action.
(ii) If e <O, the index bundles of these operators are zero in K g1 (B). In particular,
these index bundles are zero in K (B).
Remark 2.5. The operators in (2-16) are the Witten type operators introduced
in [Chen et al. 2011]. By taking N =1, W = Kx, V = 0, and letting the base
manifold B be a point in [Liu et al. 2000, Theorem 2.1], we get [Chen et al. 2011,
Theorem 3.2(ii)]. It is rather natural to establish an analogue of [Liu et al. 2000,
Theorem 2.1], which corresponds to [Chen et al. 2011, Theorem 3.2(i)]. That is
one of the motivations of Theorem 2.2.
Actually, as in [Liu et al. 2000; Liu et al. 2003], our proof of Theorem 2.2 works
under the following slightly weaker hypothesis. Let us first explain some notations.
For each n > 1, consider Z,, C S, the cyclic subgroup of order n. We have the
Z,-equivariant cohomology of M defined by

H; (M,Z)=H*(M xz, ES', 7),
and there is a natural “forgetful” map
a(S',Z,): M xz, ES' - M x g ES'
which induces a pullback
a(S', Z,)* : Hi(M,Z) — H} (M, 7).
We denote by a(S!, 1) the arrow which forgets the S!-action. Thus
a(S', D*: H; (M, Z) - H*(M, Z)

is induced by the inclusion of M into M x g1 ES! as a fiber over BS'.
Finally, note that if Z,, acts trivially on a space Y, then there is a new arrow
t* . H*(Y,Z) — H;ﬂ (Y, Z) induced by the projection?:Y Xz, ES'=YxBZ,—Y.
Let Zo = S'. Foreach 1 <n < 400, leti : M(n) — M be the inclusion of the
fixed point set of Z, C S in M, and so i induces igi : M(n) x g1 ES' — M x 1 ES!.
In the rest of this paper, we suppose that there exists some integer e € Z such
that, for 1 <n < +o0,

2-17) (8", Z)* 0it Gp1(V+3W —TX)51 —e - 7*u?)
=t oa(S', D oil 3p1(V +3W = TX)g).

As indicated in [Liu et al. 2000, Remark 2.4], the relation (2-17) clearly follows
from the hypothesis of Theorem 2.2 by pulling back and forgetting. Thus it is a
weaker hypothesis.

We can now state a slightly more general version of Theorem 2.2.
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Theorem 2.6. Let the hypothesis be as in (2-17).

(1) If e =0, the index bundles of the twisted spin® Dirac operators in Theorem 2.2
are rigid on the equivariant K -theory level for the S'-action.

(i1) Ife < 0, the index bundles of the twisted spin® Dirac operators in Theorem 2.2
are zero as elements in K G, xS! (B), and, in particular, these index bundles are
zero in K¢, (B).

The rest of this section is devoted to a proof of Theorem 2.6.

2C. Two recursive formulas. Let F = {F,} be the fixed point set of the circle
action. Then 7 : F — B is a fibration with compact fiber denoted by ¥ = {Y,}.
As in [Liu et al. 2000, (2.5)], we may and we will assume that

TX|p=TY ® P N,,

v>0

TX|rQrC=TY QrC® PN, ®N,),

v>0

(2-18)

where N, are complex vector bundles on which S! acts by sending g € S! to gV.
We also assume that (see [Liu et al. 2000, (2.6)])

(2-19) Vir=Vo @@ Ve, Wir=@® W,

v>0 v
where V,,, W, are complex vector bundles on which S' acts by sending g to g7,
and VOR is a real vector bundle on which S' acts as identity.

By (2-18), as in [Liu et al. 2000, (2.7)] , there is a natural isomorphism between
the Z,-graded C(TX)-Clifford modules over F,

(2-20) S(TX, Kx)|r =~ S(TY, Ky ® Q (det NU)*I) & ® AN,.
v>0 v>0
For a complex vector bundle R over F, let DY ® R and DY« ® R be the twisted
spin® Dirac operators on § (T Y, Kx Q),-o(det Nv)_l)) ® R over F and F,, respec-
tively.
We introduce the following locally constant functions on F (see [Liu et al. 2000,

(2.8)D:
e(N) = Z v2dimN,, d'(N)= Z vdim N,

v>0 v>0
(2-21) e(V) =Zv2dim V,, d(V) :Zvdim V,,
v>0 v>0

e(W)=Y v*dimW,, d'(W)=) vdimW,.
v

v
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As in [Liu et al. 2000, (2.9)], we write
L(N) = Q(detN,)", L(V)=Q(detV,)",

(2_22) v>0 ) v>21 X
LW)=Q(detW,)", L=L(N)" QL(V)®QL(W)".
v#0

By using (2-17) and computing as in [Liu et al. 2000, (2.10)-(2.11)], we know that
(2-23) ci(L)=0, e(V)+3-e(W)—e(N) =2e,

which means L is a trivial complex line bundle over each component F, of F,
and S! acts on L by sending g to g2¢, and G, acts on L by sending y to y3d' W)
From [Liu et al. 2000, Lemma 2.1], we know that d’(W) mod N is constant on each
connected component of M. Thus we can extend L to a trivial complex line bundle
over M, and we extend the S'-action on it by sending g € S! on the canonical
section 1 of L to g*¢- 1, and Gy acts on L by sending y to y3d/(W).

In what follows, if R(g) = Zme%z q" R, € Ksl(M)”:ql/z]], we also denote

Ind(DX @ R,,, h) by Ind(DX ® R(q), m, h). Fori =1,2,3, 4, set
(2-24) Rii=Kw®Kx)'?@R(V)® Q1(W).

As in [Liu et al. 2000, Proposition 2.1], by using Theorem 2.1, we first express
the global equivariant family index via the family indices on the fixed point set.

Proposition 2.7. Form € %Z, heZ, 1<i<4,we have the following identity in
K¢, (B):

oo
(2-25) Ind(D¥ & @ Sym,.(TX)® Rjy, m. h)

n=1

. oo
=Y (= DZeodmNegnd (DY g ® Sym (TXI) @ Ri
o n=

® Sym(@ NU> ® det Ny, m, h).

v>0 v>0

To simplify the notation, we use the same convention as in [Liu et al. 2000,
p. 945]. For ny € N*, we define a number operator P on K ¢ (M)[¢'/"] in the
following way: if R(q) = @,c(1/ny)z Rnq" € K1 (M)[[g'/™7], P acts on R(q) by
multiplication by n on R,. From now on, we simply denote Sym,.(TX), Agn(V),
and Ay (W) by Sym(TX,), A(V,), and A(W,). In this way, P acts on TX,,, V,,
and W, by multiplication by n, and the action of P on Sym(7X,), A(V,), and
A(W,,) is naturally induced by the corresponding action of P on TX,, V,, and W,,.
So the eigenspace of P =n is just given by the coefficient of ¢" of the corresponding
element R(q). For R(q) = D,c(1/npz Rnq" € K (M)[[¢'/™7], we also denote
Ind(DX @ R,,, h) by Ind(DX ® R(g), m, h).
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For p € N, we introduce the following elements in K¢ (F)[[q] (see [Liu et al.
2000, (3.6)]):

7,00 = @ Sym(T'Y,) @ @ (& Sym(Ve.») @ Sym(Fo.).

v>0 ‘n=1 n>pv

(2200 F,0=® ® (Sym(Ny ) @detN,),

v>0 0<n<pv
FP(X) = Fp(X) @ F,(X).

Then, from (2-18), over F, we have

(2-27) FO(X) = ® Sym,.(TX|r) @ Sym( @ N,) ® @ det N,

v>0 v>0

We now state two intermediate results on the relations between the family indices
on the fixed point set. These two recursive formulas are used in the next subsection
to prove Theorem 2.6.

Theorem 2.8 (compare with [Liu et al. 2000, Theorem 2.3]). For 1 <i <4, h,
peZ, p>0,me %Z, the following identity holds in K¢ (B):

(2-28) Y (DX MmN Ind(D' @ FO(X) ® Riy. m, h)

— Z(_l)pd/(N)+ZL,>O dim N,
* x Ind(D" ® F 7 (X) ® Ri1,m~+ 5 p*e(N) + S pd (N), h).
The proof of Theorem 2.8 will be given in Sections 3B-3D.

Theorem 2.9 (compare with [Liu et al. 2000, Theorem 2.4]). Foreach o, 1 <i <4,
h,peZ,p>0,me %Z, the following identity holds in K¢ (B):

(2-29) Ind(D"™ ® F 7 (X)® Ri1, m+ 3 p*e(N) + 1 pd'(N), h)
= (="M Ind(D* @ FO(X) @ Riy @ L7, m + ph + pZe, h).
The proof of Theorem 2.9 will be given in Section 3A.
2D. A proof of Theorem 2.6.

Proof. As % p1BW—-TX)g1 € H ;‘1 (X, Z) is well defined, one has the same identity
as in [Liu et al. 2000, (2.27)]:

(2-30) d'(N)+d'(W)y=0 mod 2.

From Proposition 2.7, Theorems 2.8 and 2.9, and (2-30), for 1 <i <4, h, pe Z,
p>0,me %Z, we get the following identity (compare with [Liu et al. 2000,
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2.28)));
@31) md(D¥e® & Sym,. (TX) ® Ry, m. h)
n=1

o.¢]
=1nd(D¥ ® @Sym,. (TX)® Ry @ L™, mt', ),
n=1

with
(2-32) m' =m+ ph+ p?e.

By (2-13) and (2-24), if m < 0 or m’ < 0, either side of (2-31) is identically zero,
which completes the proof of Theorem 2.6. In fact:

(1) Assume that e =0. Let h € Z, mg € %Z, h # 0 be fixed. If & > 0, we take
m’ = my. Then, for p large enough, we get m < 0 in (2-31). If & < 0, we take
m = my. Then, for p large enough, we get m’ < 0 in (2-31).

(i1) Assume thate < 0. Forh € Z, mg € %Z, we take m = mg. Then, for p large
enough, we get m’ < 0 in (2-31). O

Remark 2.10. We point out here that there is a Z/ k version of Theorem 2.6, which
is an analogue of [Liu and Yu > 2013, Theorem 4.4]. In fact, by using the mod k
localization formula for Z/k circle actions on Z/k spin® manifolds established in
[Liu and Yu > 2013, Theorem 2.7] (see also [Zhang 2003, Theorem 2.1] for the
spin case), our proof of Theorem 2.6 can be applied to the case of Z/k manifolds
with little modification.

Remark 2.11 (compare with [Liu et al. 2000, Remark 2.5]). If M is connected, by
(2-31),for 1 <i <4, in K(;),(B), we get

oo
(2-33) Ind(D¥ @ @ Sym,.(TX)® Ry )
n=1
oo
=1nd(D¥ ® @ Sym,, (TX) ® Rn1) @ [3d' (W),
n=1

where by [3d’(W)] we mean the one-dimensional complex vector space on which
y € G, acts by multiplication by y3?' ™). In particular, if B is a point and 3d’ (W) #0
mod N, we get the vanishing theorem for string® manifolds analogue to the result
of [Hirzebruch 1988, Section 10].

3. Proofs of Theorems 2.8 and 2.9

In this section, we prove the two intermediate results stated in Section 2C and used
in Section 2D to prove our main results.

In Section 3A, following [Liu et al. 2000, Section 3.2], we prove Theorem 2.9.
In Section 3B, we introduce the same refined shift operators as in [Liu et al. 2000,
Section 4.2]. In Section 3C, we construct the twisted spin® Dirac operator on
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M (n ), the fixed point set of the naturally induced Z,,;-action on M. In Section 3D,
by applying the S'-equivariant index theorem in Section 2A, we finally prove
Theorem 2.8.

3A. A proof of Theorem 2.9. We start with some notation and conventions.
Let H be the canonical basis of Lie(S!) = R, that is,

exp(tH) = exp(Z\/—_lnt),

for t € R. On the fixed point F, let Jy denote the operator which computes the
weight of the § I_action on I'(F, E |F) for any S l-equivariant vector bundle E over
M. Then Jg can be explicitly given by (see [Liu et al. 2003, (3.2)])

1
3-1 Jn=——=% ;
(3-1) H s T HIN(F ElF)

where £ denotes the infinitesimal action of H on I'(M, E).
Recall that the Z,-grading on

S(TX. Kx) ® @ Sym(TX,,)

n=1

is induced by the Z;-grading on S(TX, Kx), and the Z,-grading on

s (TY, Kx ® & (det NU)_1> ®F P(X)

v>0

is induced by the one on S(TY, Kx ®Q),-o(det NU)_I). Write

0L = @ATNO R AW, 0% =@ AN ® @ A(W,),

n=0 n=1 nel\H—% nel\H—%
(3-2) -
Fy=S(V)® ® AV, Fy=@Q A(V).
n=1 nel\H—%

There are two natural Z,-gradings on F\, F‘% (respectively Q%V, Q%V). The first
grading is induced by the Z;-grading of S(V) and the forms of homogeneous
degreesin @, A(Vy,), ®n€N+7 A(V,) (respectively Q2 ). We define Te|Fii =41
(i =1, 2) (respectively t,| Q= :I:l) to be the involution defined by this Z;- gradlng.
The second gradlng is the one for which Fj, i and Q’ (i =1, 2) are purely even,
that is, F"/Jr = Fy, Q Q’ . We denote by t, = id the involution defined by this
Z,-grading. Set ow) = QIW ® Q%V ® Q3,. We denote by 1, the Z»-grading on
Q (W) defined by

(3-3) (Q(W), 7)) = (O, 7)) ® (O, T) ® (O, To).
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Then the coefficients of ¢" (n € %Z) in (2-13) of R{(V), Ry(V), R3(V), R4(V),

Q1 (W) are exactly the Z,-graded vector subbundles of (FL, 1), (FL, ), (F2, 1),

(F2, 1), (Q(W), 11), respectively, on which P acts by multiplication by #.
Furthermore, we denote by 7, (respectively t;) the Z,-grading on

OO .
S(TX, Kx)® @ Sym(TX,) ® Fy,
n=1
(i =1, 2) induced by the above Z,-gradings. We denote by 7. (respectively ;1) the
Z>-grading on S(TX, Kx) ® Q. Sym(TX,) ® Fi, ® Q(W) (i = 1, 2) defined by
(3-4) T1=T8T, T1=178T1.

We still denote by 7, (respectively ;) the Z,-grading on

S<TY, Kx & (det Nv)_]> RF P(X)® Fi\r ® Q(W)

v>0

(i =1, 2) which is induced as in (3-4).
By (2-19), as in (2-20), there is a natural isomorphism between the Z,-graded
C (V)-Clifford modules over F,

(3-5) S(V)|p = S(VOR, Q® (det Vv)_l) ® QAV,.

v>0 v>0

Let Vo = VOR ®gr C. Using (2-19) and (3-5), we rewrite (3-2) on the fixed point
set F as follows:

0y = é/\(@ Win)® éA(@ Wan )
0= ® MA@ Wun)e @ A(D W),

eN—i—z eN+2
(3-6) oo
F =@ A(V0n® @ Vin© Vi) @5 (W, @ et ™) © @ AVa,
v>0 v>0 v>0

Fi =@ A(Von® B Vo ® Vo).

neN+1 v>0
We can reformulate Theorem 2.9 as follows.
Theorem 3.1. For eacho, h,peZ,p >0, m € %Z,fori =1,2, T =1, or T,
the following identity holds in K¢ (B):
(3-7) Ind; (D" ® (Kw ® Ky )'?*@F P(X)® Fi, ® Q(W),
m+ % p*e(N)+ 1 pd'(N), h)
= (=DM Ind, (D" @(Kw@Kx")'*@F (X)® Fj @ Q(W)®L ™7,
m+ ph + p’e, h).
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Following [Taubes 1989] in spirit, we introduce the same shift operators as in
[Liu et al. 2000, (3.9)]. For p € N, we set

r*:Nv,n_>Nv,n+pv, r*:Nv,n_>Nv,n—pv,
(3'8) Iyt Vv,n - Vv,n-‘,—pva Ty ! Vu,n - Vv,n—pv»
Iy : Wv,n — Wv,n-i—pv’ Iy ! Wv,n - Wv,n—pv-

Proposition 3.2. For p € Z, p > 0, i = 1,2, there are natural isomorphisms of
vector bundles over F:

(3-9) r(F X)) = FX)QLINY,  ru(Fy) =~ Fy @ L(V)™”.

Forany peZ, p>0,i=1,2, there are natural Gy, x S Lequivariant isomorphisms
of vector bundles over F,

(3-10) r(Qy) = Qy ® LIW) ™.
In particular, one gets the G, x § Lequivariant bundle isomorphism
(3-11) re(Q(W)) =~ Q(W) ® L(W) ™",

Proof. By Proposition 3.1 of [Liu et al. 2000], only the i = 2 case in (3-10) needs
to be proved.

Using Equations (3.14)—(3.16) of the same reference, we have a natural G, x § L
equivariant isomorphisms of vector bundles over F:

R A'Wyppy) = Q@ AMWeminw, )0 & (detW,),

n€N+%,v>0 neN+%,v>O v>0
O<n<pv O<n<pv
(3-12) 7 dim Wy—i}, (777 —pv
QR A" Wynip) =~ Q@ A V(W —n—pp) @ @) (det W) Y.
neN+%,v<0 n€N+%,v<0 v>0
O<n<—pv O<n<—pv
From (2-22) and (3-12), we get (3-10) for the case i = 2. O

The following proposition, which is an analogue of [Liu et al. 2000, Proposi-
tion 3.2], is deduced from Proposition 3.2.

Proposition 3.3. For pe Z, p > 0,i =1, 2, the G y-equivariant isomorphism of
vector bundles over F induced by (3-9), (3-11), denoted by

(3-13) r*:S(TY, KX®®(detNU)_I>®(KW®K;1)1/2®@_”(X)®F"}®Q(W)

v>0

s (TY, Kx®® (det Nv)*l)®(KW®K;1)1/2®%°(X)®F5®Q(W)®L*",

v>0

satisfies the identities
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-1

re ~Ju-rv«=Ju,
(3-14) *—1 . ! 2 1.2 1
ry P-ro=P+pJy+pe—5p°e(N)—5pd(N).

For the 7,-gradings, we have
(3-15) r*_lrer* =T,, r*_lrsr* = Ty, r*_lrlr* = (—1)Pd/(W)r1.

Proof. By the proof of [Liu et al. 2000, Proposition 3.2], we need to compute the
action of 77! - P -1, on

. —_ 4
Q A"Wy)® & A"(Wyy).
neN+%,v>O nEN+%,v<O
O<n<pv O<n<—pv

In fact, by (3-12),
(3-16) r;'-P.r,
= Y dmW,—iy)(—n+pv) + Y (dim W,—i})(—n—pv)

neN—i—%, v>0 nef\H—%, v<0
O<n<pv O<n<—pv
1.2
= P+pJH+§p e(W).

By [Liu et al. 2000, (3.21)—(3.23)], (2-21)—(2-23), and (3-16), we deduce the second
line of (3-14). The first line of (3-14) is obvious.

Consider the Z,-gradings. The first two identities of (3-15) were proved in [Liu
et al. 2003, (3.18)]. t; changes only on

® AWy ® & AWy

neN+%,v>0 neN+%,v<0

O<n<pv O<n<—pv
From (2-21) and (3-12), we get the third identity of (3-15). This completes the
proof of Proposition 3.3. O

Theorem 3.1 is a direct consequence of Proposition 3.3. This also completes the
proof of Theorem 2.9. (]

The rest of this section is devoted to a proof of Theorem 2.8.

3B. The refined shift operators. We first introduce a partition of [0, 1] as in [Liu
et al. 2000, pp. 942-943]. Set

J = {v € N | there exists « such that N, # 0 on Fy}
and

(3-17) @ = {p € (0, 1] | there exists v € J such that Bv € Z}.
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We order the elements in ® so that
P={Bi|1<i<Jy,JoeNandB; < Bis1}.

Then, for any integer 1 <i < Jy, there exist p;, n; €N, 0 < p; <n;, with (p;, n;) =1
such that

(3-18) Bi = pi/ni.

Clearly, 85, = 1. We also set pyp =0 and By =0.
For 0 < j < Jy, p € N*, we write

1;’2{(U,n)eNxN‘veJ,(p—l)v<n§pv,2:p—1+&},

v l’lj

(3-19) . s
If:{(v,n)eNxN‘ve],(p—l)v<n§pv,;>p—1+—]}.

n

Clearly, I(f is the empty set. We define %, ;(X) as in [Liu et al. 2000, (2.21)],
analogously to (2-26). More specifically, we set

(3-20) F, ;(X)

=@ Sym(TY,) ® ® (® Sym(Nu) ® & p.Sym(IVv,n))

n=1 v>0 ‘n=1 n>(ﬂ—l)v+n—;v
® ® (Sym(Ny,—,) @ det Ny)
v>0 pj
Oini(p—l)v+Ln—'jvJ

=F,X)OF, (X)® Q Sym(N,,)® @ (Sym(N, _,) @detN,),

(v.nel] wmell_, 17
where, for s € R, the notation |s| denotes the greatest integer not exceeding s. Then
(3-21) Fpo(X)=F PT(X),  Fp g (X)=F P (X).

From the construction of g;, we know that, for v € J, there is no integer in
((pj—1/nj—1)v, (pj/n;)v). Furthermore (see [Liu et al. 2000, (4.24)]),

(3-22) LMUJ _ {L(Pj/nj)vj —1 %fv =0 mod (nj),
L(pi/nv] ifv#0 mod (n;).

We use the same shift operators rj,, 1 < j < Jp as in [Liu et al. 2000, (4.21)],
which refine the shift operator r, defined in (3-8). For p € N\{0}, set

nj_1

=

Tjs - Nv,n - Nv,n—i—(p—l)v-i—pjv/nj, Fjsx : Nyn —> NUJl—(P—l)U—PjU/”j’

<

(3-23) Tjs - Von = Vv,n+(p—1)v+pjv/n/-, Fix : Voyn = ‘_/v,n—(p—l)v—pjv/nj’

=

Tjs - Wv,n - Wv,n+(17*1)v+pjv/nj, Fjx : Wyn — Wv,nf(pfl)vfpjv/nj-
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For 1 < j < Jo, we define F(8)), Fy (8,), Fy(B;), Qy (Bj), and O3, (B;) over
F as follows (compare with [Liu et al. 2000, (4.13)]):

(3-24)

FB)= @ SymTr)® @ ® , Sym(Nyu® Ny.)

O<neZ v=>0 O<neZ+n—]_v
v=0,n;/2modn; J

® @ sm( @ ( B, Nuo B, Nu))

O<v'<n;/2 v=v',—v'modn; 0<neZ+—v O<neZ—n—;v

A=A ® Voo & ( &, Vo @, V)

O<neZ 0<nel+ﬁv O<neZ— PJ

0
v=0,n;/2modn;

@ (@ ( @, Vo @,Vv,n))),

0<v'<nj/2 > v=v',—v'modn; 0<n€Z+n—;v 0<nel—%v
2 f—
FEp=a( @ vio @ ( & Ve @ V)
1 v>0 24l Piogl
O<neZ+; v=0,n;/2 modn; O<n€Z+nj vts3 O<neZ— 7 vty

@ (@ (& vwe & 7))

0<v'<n;/2 *v=v',—v'modn; 0<neZ+5—jv+% 0<n€Z—p—]v+2
1 —
OB =MD B, W @, Wu))
v O<nEZ+n—;v Ognelfn—;v
2 —
QW(ﬂj):A<®( @ Wv,n ) @ _ Wv,n>)~
vV 0<n eZ—i— v+2 0<nel—f—;v+%

Using (3-22), Equations (3-24), and computing directly, we get an analogue of
[Liu et al. 2000, Proposition 4.1] which refines Proposition 3.2:

Proposition 3.4. For pe 7, p >0, 1 < j < Jy, there are natural isomorphisms of
vector bundles over F':

rj*(g;p j—l(X)) =~
FBH® Q Sym(Nv 0) ® @ (det N, )L Ly | +(p— D+l & X (det Nyy)~ L

v>0 v>0 v>0
v=0modn; v=0modn;

).
ris(Fp i (XN =FBHO® @ Sym(Nyo)® Q (det N,y L v +p-Du+1.
Uzg;gdrz_,’ v=0

rj*(F\l/) o~ S(VOR’ (80(det Vv)_1> ® F\l/(,BJ) |
® ® A(Vao) ® @ (det V)L vl =10,

v>0 v>0
v=0modn;



ON THE WITTEN RIGIDITY THEOREM FOR STRING“ MANIFOLDS 495

— |2 1 _
F(F)~F2B)® @ A(Vyg)® @ (det V,)bnv+al+o-nr
v>0 v>0
v=n;/2modn;
ForpeZ,p>0,1<j<Jy,there are natural G, x Sl-equivariant isomorphisms
of vector bundles over F,

(3-25) 7jx(Q) =~ QW (B) ® @()) det W,

v=0modn;

® ) (det WU)L%UJHI’_])”“ ® ® (det WD)L—%vJ—(p—l)u,

v>0 v<0

(O = 0B & AW, 0® & AW,

v>0 v<0
v=n;/2modn; v=n;/2modn;

® ® et W)L v+ 3]+0-0v @ @ (det ) - v+ 3] -0- e,
v>0 v<0
Proof. By [Liu et al. 2000, Proposition 4.1], we need only prove the second
isomorphism in (3-25). In fact, using [Liu et al. 2000, (3.14)], we have the natural
Gy xS I_equivariant isomorphisms of vector bundles over F:

i iy L
(3-26) X Aln(Wv,n—(P—l)v—(I’j/nj)U):®(deth)|~”jv+2J+(p Dy

O<neZ+%,v>0 v>0

n—(p=Dv—(p;/n;)v=0 dim W, —i
® X A U (W mnt (=1 (p /n )
O<neZ+%, v>0
, = (p=Du=(p;/njv=0 Pj 1
(3-27) ® A Waniiootusp, /) = @ (det Wy L= v 2)=-br

0<neZ+%, v<0 v<0

n+(p—v+(p;/n;)v=<0 dim W —i’
® ® A W l"(Wv,—n—(p—l)v—(pj/nj)v)~
0<neZ+%, v<0
n+(p—Dv+(p;/nj)v=<0
From the last equation in (3-24), together with (3-26) and (3-27), we get the second
isomorphism in (3-25). The proof of Proposition 3.4 is complete. (]

3C. The spin Dirac operators on M (nj). Recall that there is a nontrivial circle
action on M which can be lifted to the circle actions on V and W.

For n € N\{0}, let Z,, C S! denote the cyclic subgroup of order n. Let M(n;) be
the fixed point set of the induced Z,; action on M. Then

7:M(n;)— B

is a fibration with compact fiber X (n;). Let N(n;) — M (n ;) be the normal bundle
to M(n;) in M. As in [Bott and Taubes 1989, p. 151] (see also [Liu et al. 2000,
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Section 4.1; Liu et al. 2003, Section 4.1; Taubes 1989]), we see that N(n;) and V
can be decomposed, as real vector bundles over M (n ), into

N(n,) = @ N(”])v®N(nj)n il2

O<v<n;/2

VlM(n/) = V(nj)() ® @ V(nj)v ©® V(n/)n /20

O<v<n;/2

(3-28)

where V (n j)ga is the real vector bundle on which Z,,; acts by identity, and N (n j)R P

and V(nj)n 12 are defined to be zero if n; is odd. Moreover, for 0 < v < n;/2,
N@nj), and V(n;), each admit a unique complex structure making them into
complex vector bundles on which g € Z,; acts by g". We also denote by V (n;)o,
V(nj)n; 2, and N (n )y, 2 the corresponding complexification of V' (n j)é'f, V(n j)fj /20
and N(”j)E?j/z-

Similarly, we also have the following Z,;-equivariant decomposition of W over
M (n ;) into complex vector bundles:

(3-29) Winm) = @ W,

0<v<n;

where for 0 <v <nj, g € Z,; acts on W(n;), by sending g to g".

By [Liu et al. 2000, Lemma 4.1] (which generalizes [Bott and Taubes 1989,
Lemmas 9.4 and 10.1] and [Taubes 1989, Lemma 5.1]), we know that the vector
bundles TX (n;) and V(n 1)0 are orientable and even-dimensional. Thus N (n;)
is orientable over M (n;). By (3-28), V(n ,) 2 and N (n J)n 2 are also orientable
and even-dimensional. In what follows, we ﬁx the orlentatlons of N(n J) 2 and
V(n ])R /2 Then TX (n;) and V(n J)O are naturally oriented by (3-28) and the
orlentatlons of TX,V,N(n J)n 2 and, V(n ])n 2 Let W(n ])n 2 be the underlying
real vector bundle of W(n;),, /2, which are canomcally oriented by its complex
structure.

By (2-18), (2-19), (3-28), and (3-29), we get identifications of complex vector
bundles over F (see [Liu et al. 2000, (4.9) and (4.12)]): for 0 <v <n;/2,

N(”j)v|F= @ Ny & @ Nv’a

V>0 V>0

v'=vmodn; v'=—vmodn;
(3-30) _
V(”j)vIF = @ Vo @ @ Vo,
v'>0 v'>0
v'=vmodn; v'=—vmodn;
and for 0 <wv < n;j,
(3-31) Wnhlr= @ Wy

v'=vmodn;
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We also get identifications of real vector bundles over F (see [Liu et al. 2000,
“@.1D)):

TX)lr=TY® @ Noy  Napplr= @ N

v>0 v>0
v=0modn; v=n;/2modn;
(3-32) R R R
V(”j)0|F=V0 S @ Vi, V(nj)nj/2|F= EB Vy.
v>0 v>0
v=0modn; v=n;/2modn;

Moreover, we have an identifications of complex vector bundles over F:

TX(n)|lrOrC=TY QrC® @B (N, @®N,),

v>0
v=0modn;

V(nj)OlF:VOR(@[RG:@ 69 (Vv@‘_/v)
vzg;gdnj

(3-33)

As (pj,nj)=1, we know that, forve Z, (p;j/n;)ve Zifand only if (v/n;) € Z.
Also, (p;j/nj)v € Z+ % if and only if (v/n;) € Z+ 5. Also, if v = —v'modn;,
then

(n|0<neZ+(pj/njv}={n|[0<n eZ—(pj/nj)v'}.

Using the identifications (3-30), (3-31), and (3-33), we can rewrite F(8;), F‘l, (B)),
FZ(Bj), Ol (Bj), and Q%,(B;) over F defined in (3-24) as follows (compare
with [Liu et al. 2000, (4.7)]):

(3-34) FBH= @ Sym(TX(n;)n)
O<neZ

® ® Sym< ®p.N(nj)v,n @ N(”])Un)
O<v<n;/2 0<neZ+n—;v O<n627—,v
® D Sym(N®)n;/2.0),
0<n€Z+%
(3-35) F&(ﬂj>=A( D Vjon
O<neZ
o @ ( @, Voo &, Vi)
O<v<n;/2 O<neZ+—v O<neZ——]v
) @ V(nj)nj/Z,n>a
0<neZ+1
(336) F3(8)=A( @ Vi,
O<neZ
© @ (@ Voo @ Vi)
O<v<n;/2 0<n€Z+ v+2 0<n€Z——v+2
e D V(nj)o,n>,

0<neZ+%



498 JIANQING YU AND BO LIU

33 oy =A( D ( D, Wepwme B, W),

0<v<n; 0<nez+—’v OSneZ—n—;v
G38) Oy =A( & (@ Wu e @ W)
O<v<n; 0<nez+p1 +2 0< er v+2

We indicate here that F(8;), Fy,(B;), F¢(B;), Qiy(B)), and O, (B,) in (3-24) are
the restrictions of the corresponding vector bundles in the right side of (3-34)—(3-38)
over M (n ), which will still be denoted as F(B;), F\(8;), FZ(B;), O}, (B,), and
0%, (B,). Write

(3-39) Ow(B;) = 0k (B) ® 0% (B))® 0% (B)),

which we now think of as a vector bundle over M (n;).
We now define the spin® Dirac operators on M (n ;). The following lemma follows
from the proof of [Bott and Taubes 1989, Lemmas 11.3 and 11.4].

Lemma 3.5 (compare with [Liu et al. 2000, Lemma 4.2]). Assume that (2-17) holds.
Let

(3-40) L(nj)= @ (det(N(n;)y) ®det(V(n;),)
O<v<ni/2 " )
il ® (det(W (1)) ® det(W (), —)) )" "

be the complex line bundle over M(n]) Then L(n]) has an nj -th root over M(n])
Moreover, Uy :=TX(n;) ® V(nj)0 ® W(nj) 2 ® W(nj)n 2 has a spin® struc-
ture defined by

Li:=Kx® @ (det(N(n;),)®@det(V(n,),))®(det(W (2,),;/2))’@L(n;) "/,
O<v<nj/2

and Uy :=TX (n;) ® V(nj)fi/2 ® W(nj)i‘ej/2 ® W(nj)i';‘%j/2 has a spin® structure

defined by '

Ly=Kx® & det(N(n;),)® det(W(n,)n;2))* & L(nj)" "/

O<v<n;/2

We remark that in order to define an S'- or G- action on L(n j)’(”f' /i we must
replace the S'- or G y-action by its n j-fold action. Here, by abusing notation, we
still speak of an S'- or G y-action without causing any confusion.

Let S(Uy, L) and S(U,, L) be the fundamental complex spinor bundles for
(U1, Ly) and (U,, Ly); see [Lawson and Michelsohn 1989, Appendix D]. There are
two Z;-gradings on these bundles. The first grading, denoted by 7y, is induced by
the involutions on S(Uy, L) and S(U», L,) determined by 7X (n ;) ® W(nj)fj/2 as
in (2-1). The second grading, which we denote by t,, is induced by the involution
on S(Uy, L) determined by TX (n;) & V(nj)O &) W(nj)n /2 and by the involution
on §(U,, L,) determined by U, =TX (n;) ® V(n]) 2 EB W(nj)n /20 88 in (2-1).
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In what follows, by DX/} we mean the S'-equivariant spin® Dirac operator on
S(Uy, Ly) or S(U,, Ly) over M(nj).

Corresponding to (2-8), by (3-30) and (3-31), we define S(Uy, L)  and S(Ua, L»)’
equipped with involutions 7, and 7, as follows (compare with [Liu et al. 2000,
4.16)]):

(3-41) (S(Uy, Ly, t)/t) =
(S(TY@VOR,L1® ® ([detN,®det V) '@ ® (deth)—Z),r;/r;)

v>0 v=n;/2modn;
v=0modn;
® ® A:tl(Vv)® ® A—I(Wu)® ® A(Wv)
v>0 v=n;/2modn; v=n;/2modn;
v=0modn;

and

(3-42)  (S(Ua, Ly)', 7;/1,) =
S(TY,L2® ® WetNy)'®@ ® @etVy)'e & (deth)_2>

v>0 v>0 v=n;/2modn;

v=0modn; v=n;/2modn;

® Q@ Au(V)® @ A I(WY® &K AW,).
v>0 v=n;/2modn; v=n;/2modn;

v=n;/2modn;

Then, by (2-8), fori =1, 2, we have the following isomorphisms of Clifford modules
over F preserving the Z,-gradings (compare with [Liu et al. 2000, (4.17)]):

(3-43) (SWi, L), t5/t)lF = (SWUi, L), 1) /T)Q Q@  A_i1(Ny).
vzé);lgdnj

As in [Liu et al. 2000, pp. 952], we introduce formally the following complex
line bundles over F:

(44 Li=(L7'® @ (@etN,® detV))
UE(S);[gdnj

1,2
® ® detW,)?® ®(detNU®detvv)*1®Kx>

v=n;/2modn; v>0

and

(3-45) LQ:(LZ—]@ ® deth,® & detV,
v>0 v>0
v=0modn; v=n;/2modn;

® & (deth)2®®(detNU)*@Kx)m.

v=n;/2modn; v>0
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In fact, from (2-8), Lemma 3.5, and the assumption that V is spin, one verifies easily
that ¢ (L;z) =0 mod 2 fori =1, 2, which implies that L| and L/, are well-defined
complex line bundles over F.

Then, by [Liu et al. 2000, (3.14)], (3-41)—(3-45), and the definitions of L1, L,
we get the following identifications of Clifford modules over F' (compare with [Liu
et al. 2000, (4.19)]):

(3-46) (S(Uy, L)' ® Ly, (1;/7,) ®id)
- (TY, Kx® @ (det N,,)*l) ® (S(VE, ® (et V,)™), id/7)

v>0 v>0

® ® A (V) ® ® A (W) ® ® Afl(Wv)

v>0 v>0 v<0

v=0modn; v=n;/2modn; v=n;/2modn;
® ® AWY® ® AW)® @ (detW,)?
v>0 v<0 v<0
v=n;/2modn; v=n;/2modn; v=n;/2modn;

and

(3-47) (S(Ua, L2) ® L}, (t)/7)) ®id)
- S(TY, Ky ® ®(detNU)_1) ® ® AuV)® ® A (W)

v>0 v>0 v>0

v=n;/2modn; v=n;/2modn;
® @ AuW)® @ AWY® @ AW)® @ (detW,)”
v<0 v>0 v<0 v<0
v=n;/2modn; v=n;/2modn; v=n;/2modn; v=n;/2modn;

Now we compare the Z,-gradings in (3-46) and (3-47). Set (compare with [Liu
et al. 2000, (4.20)])

Anj.Ny= Y Y. dimN,+o(NG)YE ),
nj/2<v'<n; O0<v,v=v'modn;
. R
G4y A0LVI= ) > dimVyto(Viny ),
nj/2<v'<n;j O<v,v=v'modn;
Anj, W)= > dim W,,

v<0,v=n;/2modn;

where o(N (n j)E?j /2) and o(V(n j)Ej /2) equal O or 1 depending on whether the
given orientation on N (n j)i'}/_ P and V(n j)fi /» agrees or disagrees with the complex
orientation of ' '

b N, and b V.,

v>0 v>0
v=n;/2 modn; v=n;/2 modn;

respectively.
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As explained in [Liu et al. 2003, p. 166], for the Z,-gradings induced by t;, the
differences of the Z,-gradings of (3-46) and (3-47) are both
(_I)A(}’l/',N)-i-A(n_,',W);
for the Z,-gradings induced by 7., the difference of the Z,-gradings of (3-46)
(respectively (3-47)) is

(—1) 20N +AGVI+A;, W)

A("j,N)+0(V(nj)§j/2)+A(nj,W)

).

Lemma 3.6 (compare with [Liu et al. 2000, Lemma 4.3]). Let us write

(respectively (—1)

Pj _ pi
L(Bj)1 =L} ® Q(det NU)Ln_fUJ+(p—1)v+1 ® ® (det VU)LT;UJ+(p—1)U

v>0 1 v>0 L_QUJ ZI__QU‘FLJ 3(p—1
® & (detN,) ' ® @ (det W)L ny VT2 L—m; v+ 3] =3(p=Dv
8>0d v<0
v=0modn ; ) .
' ® & (det WU)LZ_;UJ-FZLZ_;U-F%J-ﬁ-fv(p—l)v—&—l
v>0
® Q@ detW,® @ (detW,)*
v>0 v<0
v=0modn; v=n;/2 modn;
and
pj _ pi 1
L(Bj)2=L5® @ (det NU)L#UJHP—I)UH ® ® (det VU)L'T;U + 1]+
v>0 1 U>0|_—p_jvJ ZI__QU‘FLJ 3 |
® & (detN,) ' ® @ (det W,)L 7wy V2=V + 3] =3p=lv
v>0 v<0

v=0 mod n;

® & (det W) L%UJ“L%U + 5 |+3(p-Du+1

v>0

® & detW,® & (detW,)>%
v>0 v<0

v=0 mod n; v=n;/2 modn;

Then L(B;j)1 and L(B;)2 can be extended naturally to G, x S Lequivariant complex
line bundles over M (n ;) which we will still denote by L(B;)1 and L(f;).

Proof. We introduce the following line bundle over M (n):
(3-49) L°(Bj) = @ (det(N(nj),) ® det(V (n;).)
O<v<n;/2
® (det(W(n))y) @ det(W (1n),-1))°)
where, as in [Liu et al. 2003, (4.35)], we define w by

L&szﬁv_M
n, n; nj

—w)—rn;)v
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As in [Liu et al. 2003, (4.38); Liu et al. 2000, (4.28)], Lemma 3.5 implies that
L?(B j)l/ "7 is well-defined over M (n ). Direct calculation shows that

LB =L"P D rimgLo@)/e & det(W(n)),)® [det(W(n)a,2)*

O<v<n;/2

® ® ®  (det(W(n)),) @det(W(n;)n,—0))>

1<m<p;/2 m—%<(pj/nj)v<m
and

L(Bpa=L"P"D=Pi/mgLo@)/me & det(W(n)),)® (det(W(n)u,2)*

O<v<n;/2
® ® ® (([det(W(n,)y) ®det(W(n,),,—))* ® det(V (n),)).
l<m=pj/2 m7%<(pj/nj)v<m
The proof of Lemma 3.6 is complete. (]

To simplify the notation, we introduce the following locally constant functions
on F (compare with [Liu et al. 2003, (4.45); Liu et al. 2000, (4.30)]):

J—I—(p—l)v)( Piy +(p—1)v+1)

(3-50) 8‘1,V=——U2>:(d1mW) ((L i
(L J-i—(p—l)v)(Z(Lp o[+ (= Do) +1))
((—L—JJ (p—1w)(- _Z—jv_—(p—l)v—i—l)
o]+ o= 00) (=[] = 0= 10) +1))

(3-51) &2 = —% 3 @imw,) - ((Lﬂv + %J F(p— 1)v)2

nj

T (I et

S amu (| 2es o)

v<0

+2(”f v (p— 1)0({—%% %J —(p— 1)v)>,

nj J

JI3

- % 3 (dim

W,)
+

v>0

(3-52) & = %Z(dim N, —dim Vﬁ((ti—;vJ—i—(p—l)v) <L5—jvJ+(p—l)v+l)
v>0

—(Z—jv F(p— 1)v) (Z(L%UJ t(p— 1)v) + 1))
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(3-53) &)= Z(dlmN ). ((L J +(p— 1)u)(V’J J F(p—Tu+ 1)

<p;v+<p—nv>< (2] +0-) 1)
— 3 Y imvy)- (({ -
(

v>0

2(pfv+(p 1)v) L J—i—(p—l)v))

As in [Liu et al. 2000, (2.23)], for 0 < j < Jp, we set

e(p, B, N) =5 > (dimN,)- (L—]vJ—F(p—l)v)

(3-54) . x (Ls—jvJ +(p—Do+1),
d'(p. . N) = %(dimzvv) : (u’—jvJ +(p—1v).

Thene(p, Bj, N)andd'(p, Bj, N) are locally constant functions on F'. In particular,
we have
e(p, Bo, N) = 3(p = 1)*e(N) + 3(p — Dd'(N),

(3-55) e(p. Br» N) =5 p*e(N) + 3 pd (N),
d'(p, Bi» N)=d'(p+1, o, N) = pd'(N).

Proposition 3.7 (compare with [Liu et al. 2000, Proposition 4.2]). Fori =1, 2,
the G y-equivariant isomorphisms of complex vector bundles over F induced by
Proposition 3.4 and (3-46)—(3-47),

- S(TY, Kx® ®(deth)_l> ® (Kw @ Kx)'2 @ %, j_1(X)® Fi, ® Q(W)

v>0
— S(U;, L) ® (Kw @ KxH'? @ F(B)) ® Fi, ()
ROwBHRLB)i® & Sym(N,o)

v>0
v=0 mod n;

and

rip:S (TY, Kx ® @ (det N,,)—1> ®(Kw®@KH'"2@F, ;(X)® Fi ® Q(W)

v>0
— S(U;, L) @ (Kw @ KxH'? @ F(B)) ® Fi,(B))
QOwBHALB)Hi® Q (Sym(N,o)@detN,)

v>0
v=0 mod n;

have the following properties:
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(i) Fori=1,2andy =1, 2, we have
_ _ D
(3'56) riyl‘JH'riy:JHa r,'yl‘P'riy:P+<n_j.+(p_l)>JH+8iy,
j
where the €;, are given by

ei1 = & + ey +2¢e8, —e(p, Bj—1, N),

(3-57) | 5
Eip = &; +8W +28W —e(p, ,3]', N)

(i) Fori=1,2andy =1, 2, we have

(3-58) rttr, = (=Dl !

-1
iy Tsliy = (=D, Iy Tliy = (=D,

rl.;
where the |1; are given by
__Z ; pj . . .

w1 = (dimVy)| =v |+ A, N)+ A, V)+Anj, W) mod 2,

n
v>0 J

o =— > (dimV,)- Lﬁwlj + A N)+o(V(nj)y o)+ An;, W) mod 2,
v>0 i 2 '
w3 =A(n;, N)+A(n;, W) mod 2,
_ i (] 2: lJ _ )
pa = (dim W,) (Lnj vt3 |+ (=D
v>0
i (] =2i lJ —(p— )
+3 (dim W) ({ wlotg [ (= 1v) moa2
v<0 :

Proof. By the proof of [Liu et al. 2000, Proposition 4.2], we need to compute the
action of r;! - P -r, on

® A (Wyp) ® & A (W ).
O<neZ+%,v>0 O<neZ+%,v<O
n—(p—Dv—(p;/n;)v=0 n+(p—Dv+(p;/n;)v=<0

In fact, by (3-26) and (3-27), as in (3-16), we get

(3-59) r;l.P.r,= Z (diva—in)(—n+(p—1)v+p—J:v)
O<neZ+%,v>O nj

n—(p—Dv—(p;/n;)v=<0

. . Pj
+ E dmW,—i)){—-n—(p—Dv—=—=
(dim W, zn)< n—(p v njv)
O<neZ+%,v<O

n+(p—1)v+(p;/n;)v=<0
= P+(p— 1+%>JH+8‘2,V.

J

By [Liu et al. 2000, (4.36)—(4.38)] and (3-59), we deduce the second identity in
(3-56). The first identity in (3-56) is obvious.
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Consider the Z;-gradings. By [Liu et al. 2003, (4.49)—(4.50)] and the discussion
following (3-48), we get the first two identities in (3-58). Observe that t; changes
only on

X A" (Wy0) ® & A (Wy ).
0<n€Z+%,v>0 O<n€Z+%,v<O
n—(p—Dv—(p;/n;)v=<0 n+(p—Dv+(p;/n;j)v<0

From (3-26) and (3-27), we get the third identity in (3-58). U
3D. A proof of Theorem 2.8.

Lemma 3.8 (compare with [Liu et al. 2000, Lemmas 4.4 and 4.6]). For each
connected component M' of M (n ), the following functions are independent on the
connected components of F in M-

8,-+8%,V+28%V, i=1,2,
(3-60) d'(p, Bj, N)+ u; + 14 mod 2, i=1,2,3,
d'(p.Bj—1. N)+ ) dim Ny +pi +pa mod2, i=1,2,3.
O<v

Proof. Recall that |_§—j v = %v - %:’) By using (3-31), we explicitly express &},

and S%V defined in (3-50)—(3-51) as follows:

(3-61) ey =1(p—1+p;/n)?e(W)+LdimW(n,),,

a)(v)w( v)
+% Z —————(dim W(n;), +dim W (n;),; ),
O<v<n;/2 j
and

(3-62) &fy =3(p—1+pj/nj)’e(W) — gdim W (n;), 2
3 > (“)(”)) (dim W (n}), + dim W (n}),, )
n;j

O<m=(p;—1)/2 m<5—;v<m+2

_% Z Z (%) (dim W(nj)v+dlm W(”])n,—v)
m<p J

1_Pj
111—§< n; v<<m
J

=

0<m

By using (2-23), (3-61), (3-62), and the explicit expressions of &; given in [Liu

et al. 2003, (4.56)—(4.57)], we know the functions in the first line of (3-60) are
independent on the connected components of F in M’.

Now consider the functions in the rest of the lines of (3-60). By (2-30), (3-30),
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(3-32), (3-48) and [Liu et al. 2000, Lemma 4.5], we get

(3-63) d'(p,Bj, N)+ui+ma= Y Y dimN(n)),+3dimg N(n)y

O0<m=p;/2 O<v<n;/2

m—§<&v<m
nj

+Z(dlmN )L J-I—Z(dim wWy) {%v—i—%J

v>0 v>0 J

IJ +o(N(nj)y ) + Alnj, W) mod 2.

+ Z(dlmW )L——v + 3
nj

v<0

But, by [Liu et al. 2000, Lemma 4.5], as wy(W @ TX)g = 0, we know that,
modulo 2,

364 Y (dimNo)| P 3 |+ Y (dimwo)| Lo+ 7|
nj

v>0 v>0 nj

+ 3 (dim Wv){—%v + %J +o(NmpE )+ Alnj, W)
J

v<0

is independent on the connected components of F in M’. Thus, the independence
on the connected components of F in M’ of the functions in the second line of
(3-60) is proved, which, combined with [Liu et al. 2000, (4.42)], implies the same
independent property of the functions in the third line of (3-60). U

By (3-34)—(3-39) and Lemma 3.6, we know that the Dirac operator
DX"D @ F(B)) ® Fyy(B)) ® Qw(B)) ® L(B))i

(i =1, 2) is well-defined on M (n;). Observe that (2-12) in Theorem 2.1 is compat-
ible with the G y-action. Thus, by using Proposition 3.7, Lemma 3.8 and applying
Theorem 2.1 to each connected component of M (n;) separately, we deduce that,
fori=1,2,1<j<Jo,me(1/0)Z,he”Z, t =rt, or 15,

(3-65 Y (=D)AL dimNong, (DY @ (Kyw @ Ky')'/?
) ®Fpj1(X)® Fly @ Q(W), m+e(p, Bj_1, N), h)

— Z(—l)d/(Pvﬁj*I’N)+ZU>0dimN"+’u' Il’ld-,'- <DX(n]) ® (KW ® K};l)l/Z ® 9‘:(}8])

® Fyy(B)) ® Qw(B)) ® L(B))i»m+&; + ey + 265, + (%—I-(P - 1)>h,h>
j

=Y (D) PANAE o dm N g (DY @ (K ® Ky @ F,(X)
’ ® Fj, ® Q(W), m+e(p, B;, N), h),
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where ) 5 means the sum over all the connected components of M (n ). In (3-65),
if T =151, 0= w3+ pg; if Tt = t.1, £ = i + 4. Combining (3-55) with (3-65),
we get (2-28). The proof of Theorem 2.8 is complete.
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